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Preface

The integral equation method is an elegant mathematical way of transforming ellip-
tic partial differential equations (PDEs) into boundary integral equations (BIEs).
The focus of this book is the systematic development of efficient numerical methods
for the solution of these boundary integral equations and therefore of the underlying
differential equations.

The integral equation method has a long history that is closely linked to math-
ematicians such as I. Fredholm, D. Hilbert, E. Nystrom, J. Hadamard, J. Plemelj,
J. Radon and many others. Here is a list of some of the original works on the subject:
[46,96,101, 126, 164,165,173,175-177,181, 182, 188,214,229].

With the introduction of variational methods for partial differential equations at
the beginning of the twentieth century, integral equations lost some of their impor-
tance for the area of analysis. This was due to the difficulty of formulating precise
results on existence and uniqueness by means of classical integral equations.

Since the middle of the twentieth century the need for numerical methods for
partial differential methods began to grow. This was reflected also in the rapidly
increasing interest in integral equation methods. Some advantages of this approach
for certain classes of problems compared to domain methods (difference methods
and finite elements) are given in the following:

1. The treatment of equations on spatial domains with a complex geometry is sim-
pler with respect to mesh generation — this is the subdivision of the domain
into small geometric elements — for boundary integral equations than for domain
methods, since only a surface mesh of the domain has to be generated as opposed
to an entire volume mesh.

2. The numerical treatment of problems on unbounded domains is especially simple
with integral equation methods, while the treatment by means of domain meth-
ods requires the generation of a mesh on an unbounded domain, which is rather
problematic.

3. For some parameter dependent problems, for example, from the area of electro-
magnetism at high frequencies, numerical methods for integral equations remain
more stable for extreme parameters than for domain discretizations.
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viii Preface

4. The large linear systems of equations that appear in almost every discretization
method have a better condition number than the systems of equations for domain
discretizations. Basic iterative methods thus converge more rapidly.

5. The drawbacks of the integral equation method, such as the numerical integra-
tions that are necessary to generate and solve the systems of equations, are being
resolved with numerical methods that have been under constant development
since about 1980.

The Nystrom or quadrature formula methods and the collocation method are clas-
sical numerical solution methods for integral equations. One of the first textbooks
on this topic was written by K.E. Atkinson [7] with an extended new edition [8].
These methods are suited to the solution of boundary integral equations of the sec-
ond kind. These are integral equations with operators of the form / 4+ K, where /
denotes the identity and K an integral operator. They can be implemented on com-
puters relatively easily, although they do have two significant drawbacks: (a) the
Nystrom and collocation methods cannot be applied to all boundary integral equa-
tions that appear in connection with elliptic boundary value problems and (b) the
convergence and stability of the methods can only be shown for very restrictive
conditions imposed on the underlying differential equation and the smoothness of
the physical domain.

Since about 1980-1990 the Galerkin methods for the discretization of boundary
integral equations have been gaining importance for practical problems. From a the-
oretical point of view this method is superior to the alternatives such as the Nystrom
and collocation methods: stability, consistency and convergence of the Galerkin
method can be shown for a very general class of boundary integral equation. The
approach is based on a variational formulation of boundary integral equations as
opposed to the pointwise, classical approach. This approach is explained in detail
in, for example, [72,74,80,167,171,238] or in the monographs [137, 162, 170].

The breakthrough for the Galerkin methods for practical, three-dimensional
problems was achieved through the development of numerical methods for the
approximation of integrals in order to determine the system matrix and through
the development of fast algorithms to represent the non-local (boundary integral)
operators.

The focus of this book is the systematic development of numerical methods to
determine the Galerkin solution of boundary integral equations. All necessary tools
from the area of analysis are presented, most of which are proven and derived; some,
however, are only cited so that this book does not become too expansive. This book
can be used as the basis for a lecture course of four hours a week on the numerics
of boundary integral equations, consisting of an intensive short course on functional
analysis and with a focus on the numerical methods. Some of the subsections bridge
the gap between the textbook and current areas of research or should be seen as
complements to the material. They are marked by a star (x). The applications from
the area of electromagnetism (Maxwell and wave equations, Helmholtz equation for
high frequencies), for which integral equation methods are currently being devel-
oped intensively, serve as examples. The methods that are dealt with in this book
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form the basis with which to treat such problems. We will, however, not elaborate
on the concrete applications.

So as not to go into too much detail we refrained from representing methods to
couple finite elements with boundary elements and domain decomposition methods
(see [49,54,71,73,135,149]).

First and foremost the aim of this book is to represent and mathematically analyze
efficient methods. Its purpose is not the treatment of concrete applications from the
area of engineering. For this the books [13,23,32] may serve as an introduction.

Other textbooks and monographs from the area of numerical analysis for integral
equations include [23,60, 117,216].

This book is the translation of the German version [204] and extended by chap-
ters on p-parametric surface approximation and a posteriori error estimates — thanks
are due to E. Louw for the translation of the German version. In addition we have
corrected some misprints and incorporated additional material at various places.

The authors would like to thank their colleagues Profs. W. Hackbusch, R. Hipt-
mair and W. Wendland for the numerous discussions concerning the topics of this
book, their co-workers L. Banjai, N. Krzebek, M. Rech, N. Stahn, R. Warnke for
their support during the reading and correction of the manuscript. We also owe
thanks to the Springer-Verlag for their understanding and unproblematic
cooperation.

Ziirich Stefan Sauter
July 2010 Christoph Schwab






Contents

1 Introduction ................c.iiiiiiiiii 1
1.1 The Concept of the Boundary Element Method........................ 1
1.1.1  Basic Terminology .........cccooiiiiiiiiiiiiiiiiiiii ... 1
1.1.2 A Physical Example ..........c.ooiiiiiiiiiiiiiiiii 3
1.1.3  Fundamental Solutions ..................coooiiiiiiian 7
1.1.4  Potentials and Boundary Integral Operators .................. 7
1.2 Numerical Analysis of Boundary Integral Equations .................. 10
1.2.1  GalerkinMethod ..ot 10
1.2.2  Efficient Methods for the Solution
of the Galerkin Equations.................oooviiiiiiiiiiinnnn. 12
1.2.2.1  Quadrature Methods .................cceveviiennn 12
1.2.2.2  Solving the Linear System of Equations .......... 13
1.2.23  Cluster Method ...........ccoiiiiiiiiiiiiiii... 14
1.2.2.4  Surface ApproxXimation ..............cccevviuuee... 15
1.2.2.5 A Posteriori Error Estimation...................... 17
2 Elliptic Differential Equations............................oooiiiiiiiiinn, 21
2.1  Elementary Functional Analysis ..........cccoviiiiiiiieiiiiiiieeann. 21
2.1.1  Banach and Hilbert Spaces ..............cooeeiiiiiiiieea.. 21
2.1.1.1  Normed Spaces.........vveeeeiiiiiiiieieeninnnnn.. 21
2.1.1.2  Linear Operators ..........oveeeeeeeeesaannannnnnnn. 22
2.1.1.3  Banach Spaces............ccccvviiiiiiiiiiinnnn... 23
2.1.1.4  Embeddings .........oooiiiiiiiiiiiiiii 24
2.1.1.5 Hilbert Spaces .......ccvveeiiiiiiiiii i, 24
2.1.2  Dual SPaces ....oouuuiiieiiiii e 25
2.1.2.1  Dual Space of a Normed, Linear Space ........... 25
2.1.22 Dual Operator ..........ccceviiiiiiiiiiieeiinnnnn... 26
2.1.23  Adjoint Operator ...........ccooiiiiiiiieeiiina... 27
2.1.2.4  Gelfand Triple .....oovevvieiiiiiiiiiii e 29
2.1.2.5  Weak CONVergence ........c.cooevvuiieeeeennnnnnne.. 30
2.1.3  Compact OPerators ...........c.ueeeeeeruuineeeeennnnnneeennn. 30
2.14  Fredholm-Riesz—Schauder Theory ........................... 31
2.1.5  Bilinear and Sesquilinear Forms ........................... ... 32

xi



xii

Contents
2.1.6  Existence Theorems..........uuuuuuuuuuuunnininnninnnnnanns 35
2.1.7  Interpolation SPacCes ..........cuvuiieeiiiiiiiiiieaiiiiiieen, 46
2.2 GeometriC TOOIS ....vvieiit e 47
2.2.1  FUNCLION SPACES ... vvvttttttttititt e eeeaaes 47
2.2.2  Smoothness of DOMAINS .............uuuuuuuuiuiuniniinnnnenas 50
2.2.3  Normal VECtOT ...ttt 52
2.24 Boundary IntegralS............cooiiiiiiiiiiiiiiiiiiiiii e, 53
2.3 Sobolev Spaces on Domains €2 ..........ccoiiiiiiiiiiiiii i 54
2.4 Sobolev Spaceson Surfaces I' ...........cooiiiiiiiiiiiii 57
2.4.1  Definition of Sobolev Spaceson I'............................ 57
242 Sobolev Spaceson T'g C T ..ovvviiiiiiiiiiiias 59
2.5 Embedding Theorems ..........coovviiiiiiiieiiiiiiiii i, 60
2.6 Trace OPErators ... ....eeesuuuuetee ettt e e e e e eaeeeenns 63
2.7  Green’s Formulas and Normal Derivatives ............................. 66
PR TN T0) 1818 (0] W @] o153 #2170 72
2.9  Elliptic Boundary Value Problems........................oeiiiaa 76
2.9.1  Classical Formulation of Elliptic Boundary
Value Problems.............cooviiiiiiiiiiieeeeeean 76
2.9.1.1 Interior Dirichlet Problem (IDP) .................. 76
2.9.1.2 Interior Neumann Problem (INP) ................. 76
2.9.1.3  Interior Mixed Boundary Value
Problem (IMP) ..., 77
2.9.1.4  Exterior Dirichlet Problem (EDP)................. 77
2.9.1.5 Exterior Neumann Problem (ENP) ................ 78
2.9.1.6  Exterior Mixed Boundary Value
Problem (EMP)..........ccooiiiiiiiiiiiiii 78
2.9.1.7 Transmission Problem (TP)........................ 78
2.9.2  Variational Formulation of Elliptic Boundary
Value Problems...........ccooiiiiiiiiii i 79
2.9.2.1 Interior Dirichlet Problem (IDP) .................. 79
2.9.2.2  Interior Neumann Problem (INP) ................. 80
2.9.23  Interior Mixed Boundary Value
Problem (IMP) ... 80
2.9.2.4  Function Spaces for Exterior Problems ........... 81
2.9.2.5  Exterior Dirichlet Problem (EDP)................. 83
2.9.2.6  Exterior Neumann Problem (ENP)................ 84
2.9.277  Exterior Mixed Boundary Value
Problem (EMP)............coooiiiiiiii 85
2.9.2.8  Transmission Problem (TP)........................ 85
2.9.3  Equivalence of Strong and Weak Formulation ............... 86
2.9.3.1 Interior Problems...............coooiiiiniiiiinn.n. 86
2.9.3.2  Exterior Problems ....................cooiiiiiia 87
2.10 Existence and UniqUeNESS .........covuuuuiiieeeiniiiiiiieeeiiineeennn. 89
2.10.1 Interior Problems............ooiiiiiiiiiiiiiiii i 91

2.10.1.1 Interior Dirichlet Problem ......................... 91



Contents xiii
2.10.1.2 Interior Neumann Problem ........................ 92
2.10.1.3 Interior Mixed Boundary Value Problem ......... 93
2.10.2  Exterior Problems.............cooiiiiiiiiiiiiii i 93
2.10.2.1 General Elliptic Operator
With @mine > D)% ooooeeii 93
2.10.2.2 Laplace Operator..........coevevuieinnnieinneenns 94
2.10.2.3 Helmholtz Equation ................c.oooeiiiean 99
3 Elliptic Boundary Integral Equations .............................ooiaa. 101
3.1  Boundary Integral Operators ...........ovvvviiiiiiiiiiieieeeeeeenannnnn. 101
3.1.1  NewtonPotential ... 103
3.1.2  Mapping Properties of the Boundary Integral Operators..... 112
3.2 Regularity of the Solutions of the Boundary Integral Equations ...... 114
3.3 Jump Relations of the Potentials and Explicit
Representation Formulas ...........cooiiiiiiiiiiiiiiiiiiieeia 115
3.3.1  Jump Properties of the Potentials ................ccooeiiiins 115
3.3.2  Explicit Representation of the Boundary
Integral Operator V ..ot 117
3.3.3  Explicit Representation of the Boundary
Integral Operators K and K/ ............ccooviiiiiiiniinnnnn. 122
3.3.4  Explicit Representation of the Boundary
Integral Operator W ... 132
3.4  Integral Equations for Elliptic Boundary Value Problems............. 139
34.1 Thelndirect Method ............cccoiiiiiiiiiiiiiiiii 140
34.1.1 Interior Problems...................oooiiiii. 140
34.1.2 Exterior Problems ....................ooo 144
3.4.1.3 Transmission Problem ......................... ... 144
342 TheDirect Method...........ccooiiiiiiiiiiiiiii i 145
3.42.1 Interior Problems................coooiiiiiin. 145
34.2.2 Exterior Problems....................ooo 147
3.4.3  Comparison Between Direct and Indirect Method ........... 148
3.5  Unique Solvability of the Boundary Integral Equations ............... 149
3.5.1  Existence and Uniqueness for Closed Surfaces
and Dirichlet or Neumann Boundary Conditions............. 149
3.5.2  Existence and Uniqueness for the Mixed
Boundary Value Problem ........................oooo 153
3.5.3  Screen Problems .............uuuuiiiiiiiiiiiiiii 156
3.6 Calderdn Projector.........o.uveeiiiiiiiiiii i 157
3.7 Poincaré—Steklov Operator...........oouveieieiiiiiiiiieeiiniieeeann. 160
3.8 Invertibility of Boundary Integral Operators of the Second Kind ..... 162
3.9  Boundary Integral Equations for the Helmholtz Equation............. 168
3.9.1 Helmholtz Equation.................ccoiiiiiiiiiiiiin. 168
3.9.2 Integral Equations and Resonances ........................... 169
3.9.3  Existence of Solutions of the Exterior Problem .............. 172
3.9.4  Modified Integral EQUations ............cooouuuuuuiunnnnnnnnans 175

3.10 Bibliographical Remarks on Variational BIEs ......................... 177



Xiv

Contents

4 Boundary Element Methods .....................ooooiiiiiiiiiiiiiiiia,

4.1

4.2

4.3

4.4
45
4.6

Boundary Elements for the Potential Equationin R3..................
4.1.1  Model Problem 1: Dirichlet Problem .........................
4.1.2  Surface Meshes ...........ccooiiiiiiiiiiiiiiiii
4.1.3  Discontinuous Boundary Elements ...........................
4.1.4  Galerkin Boundary Element Method..........................
4.1.5 Convergence Rate of Discontinuous Boundary Elements....
4.1.6  Model Problem 2: Neumann Problem ........................
4.1.7  Continuous Boundary Elements.......................oouan.
4.1.8  Galerkin BEM with Continuous Boundary Elements ........
4.19  Convergence Rates with Continuous Boundary Elements ...
4.1.10 Model Problem 3: Mixed Boundary Value Problem .........
4.1.11 Model Problem 4: Screen Problems...........................
Convergence of Abstract Galerkin Methods ...........................
4.2.1  Abstract Variational Problem.........................
4.2.2  Galerkin ApproxXimation.........oovveeeeeeennieeanaeeennnnnn.
4.2.3  Compact Perturbations................coooiiiiiiiiii..
4.2.4  Consistent Perturbations: Strang’s Lemma ...................
4.2.5  Aubin—Nitsche Duality Technique .....................oooo.t.

4.2.5.1  Errors in Functionals of the Solution..............

4.2.5.2  Perturbations.............ooooiiiiiiiiiiiiiii
Proof of the Approximation Property............ccoooiiiiiiiii..
4.3.1  Approximation Properties on Plane Panels ...................
4.3.2  Approximation on Curved Panels .............................
4.3.3  Continuity of Functions in Hj (T') fors > 1 ................

4.3.4  Approximation Properties of SZ Tl e
4.3.5  Approximation Properties of Sé’ O
Inverse EStimates ........coueiiiiiiiiii i
Condition of the System Matrices ..............uuuuuuuiiiniuiinnnnnnnns
Bibliographical Remarks and Further Results..........................

5 Generating the Matrix Coefficients ...............................iiaa.

5.1

52

Kernel Functions and Strongly Singular Integrals .....................
5.1.1  Geometric Conditions.............ccevviiiiiiiiiiiiiiiieee..
5.1.2  Cauchy-Singular Integrals ............ccoouiiiiiiiiiininnna.
5.1.3  Explicit Conditions on Cauchy-Singular Kernel

Functions .........cooiiiiii
5.1.4  Kernel Functions in Local Coordinates .......................
Relative Coordinates ...........o.ueeeieeiiiiiiiiieeiiiiiiii e,
5.2.1 Identical Panels ...
522 Common Edge ........couuvuuiiiiiiiiiiiiiiia
523 CommOn VEITEX ... ..uvuuetttttiii e
5.2.4  Overview: Regularizing Coordinate Transformations........
5.2.5 Evaluating the Right-Hand Side

and the Integral-Free Term .......................ooooiat.



Contents XV
5.3 Numerical Integration .............oooiiiiiiiiiiiiiiiii e, 321
5.3.1  Numerical Quadrature Methods .............................. 321
5.3.1.1  Simple Quadrature Methods ....................... 322
5.3.1.2  Tensor-Gauss Quadrature ......................... 323
5.3.2  Local Quadrature Error Estimates............................. 324
5.3.2.1  Local Error Estimates for Simple
Quadrature Methods .................cooeeeiiiil 324
5.3.2.2  Derivative Free Quadrature Error
Estimates for Analytic Integrands ................. 329
5.3.2.3  Estimates of the Analyticity Ellipses
of the Regularized Integrands...................... 331
5.3.2.4  Quadrature Orders for Regularized
Kernel Functions ...t 341
5.3.3  The Influence of Quadrature on the Discretization Error ....342
5.3.4  Overview of the Quadrature Orders
for the Galerkin Method with Quadrature .................... 351
5.3.4.1 Integral Equations of Negative Order ............. 351
5.3.4.2 Equations of Order Zero .............ccccovvuvue... 351
5.3.4.3  Equations of Positive Order........................ 352
5.4  Additional Results and Quadrature Techniques ........................ 352
6 Solution of Linear Systems of Equations.................................... 353
6.1  cgMethod ..ot 354
6.1.1 cgBasic Algorithm ... 354
6.1.2  Preconditioning Methods ... 356
6.1.3  Orthogonality Relations ..., 357
6.1.4  Convergence Rate of the cg Method .......................... 358
6.1.5  GeneralizationS..........c.cevvviiieeeeeiniieeenniieeeann. 360
6.2  Descent Methods for Non-symmetric Systems......................... 361
6.2.1 Descent MethodS ............uuuuuuuiiiiiiiiiiieaas 361
6.2.2  Convergence Rate of MR and Orthomin(k) .................. 362
6.3  Iterative Solvers for Equations of Negative Order ..................... 364
6.4  Iterative Solvers for Equations of Positive Order ...................... 367
6.4.1 Integral Equations of Positive Order .......................... 367
6.4.2  Tterative Methods .........ccooiiiiiiiiiiiiiiiiiiiiiiii e, 370
6.4.3 Multi-grid Methods ..o 374
6.43.1  Motvation .......oovviiiiiiiiii i 375
6.4.3.2  Multi-grid Method for Integral
Equations of Positive Order........................ 378
6.4.3.3  Nested Iterations ..........cccoviiiiiiiieeninnnn... 381
6.4.3.4  Convergence Analysis for Multi-grid Methods ...382
6.5  Multi-grid Methods for Equations of Negative Order ................. 399
6.6  Further Remarks and Results on Iterative Solvers of BIEs ............ 402



xvi Contents
7 Cluster Methods. ........ ...t e 403
7.1 The Cluster Algorithm............coooiiiiiiiiii e, 404
7.1.1  Conditions on the Integral Operator........................... 404
7.1.2  Cluster Tree and Admissible Covering ....................... 405
7.1.3  Approximation of the Kernel Function ....................... 409
7.1.3.1  CebySev Interpolation .............................. 410
7.1.3.2  Multipole Expansion ..............cooeeeeiiinn... 414
7.1.3.3  Abstract Cluster Approximation................... 415
7.1.4  The Matrix-Vector Multiplication in the Cluster Format..... 416
7.1.4.1  Computation the Far-Field
Coefficients ...........coovviiiiiiiiiiiiiii, 420
7.1.42  Cluster—Cluster Interaction ........................ 421
7.1.4.3  Evaluating the Cluster
Approximation of a Matrix-Vector
Multiplication ..., 421
7.1.4.4  Algorithmic Description
of the Cluster Method ................cooiiiet. 423
7.2 Realization of the Subalgorithms ..., 425
7.2.1  Algorithmic Realization of the éebyéev Approximation ....425
7.2.2  Expansion with Variable Order............................. .. 431
7.3 Error Analysis for the Cluster Method...........................ooo. .. 433
7.3.1  Local Error Estimates ... ......oovviiieiiiiiniiiiiennnnnn... 433
7.3.1.1  Local Error Estimates
for the Cebyéev Interpolation...................... 433
7.3.2  Global Error Estimates...........coviiiiiiiiiiiiiiiiiiiinn. 448
7.32.1  L2-Estimate for the Clustering Error
Without Integration by Parts....................... 449
7.3.2.2  L2-Estimates for the Cluster Method
with Integration by Parts........................ .. 452
7.3.2.3  Stability and Consistency
of the Cluster Method ........................ool. 453
7.4 The Complexity of the Cluster Method....................ooiiiiitt. 454
7.4.1  Number of Clusters and Blocks ...............oooeiiiiit. 455
7.4.2  The Algorithmic Complexity of the Cluster Method.......... 460
7.5  Cluster Method for Collocation Methods..............cccoviiieeeet. 463
7.6 Remarks and Additional Results..................oooooiiii. 464
8 p-Parametric Surface Approximation....................................... 467
8.1  Discretization of Boundary Integral Equations
with Surface ApProxXimations ............oeuuveeeeeiiiiiieeeennnnnnee.. 467
8.1.1  p-Parametric Surface Meshes
for Globally Smooth Surfaces..................coovviiiiini. 467

8.1.2  (k,p)-Boundary Element Spaces
with p-Parametric Surface Approximation ................... 471



Contents xvii
8.1.3  Discretization of Boundary Integral Equations
with p-Parametric Surface Approximation ................... 472
8.2 Convergence ANAalYSiS .......ceeuiuuiiiiteetiiie et 475
8.3  Overview of the Orders of the p-Parametric
Surface ApproXimations...........cevvuurieeeeeriiiiieeeeeniiineeennn. 495
8.4  Elementary Differential Geometry .............cooeviiiiiiiiiiennnnnn. 498
9 A Posteriori Error Estimation............................ 517
9.1  Preliminaries ..........oooiiuiiiiiiiiiii i 518
9.2 Local Error Indicators and A Posteriori Error Estimators ............. 521
9.2.1  Operators of Negative Order ................ccoeeviiiiee... 521
9.2.2  Operators of Non-negative Order ..................ccoeenn. 523
9.3 Proof of Efficiency and Reliability...............ooooiiiiiiiiiin. 523
9.3.1  Analysis of Operators of Negative Order ..................... 524
9.3.2  Analysis of Operators of Non-negative Order ................ 534
9.3.3  Bibliographical Remarks, Further Results
and Open Problems ..o 543
References. ... 545
Index of Symbols ... 555
IndexX ... 559






Chapter 1
Introduction

Many physical processes can be described by systems of linear and non-linear differ-
ential and integral equations. Only in very few special cases can such equations be
solved analytically, which is why numerical methods have to be developed for their
solution. In light of the complexity of the problems that appear in practice, it is unre-
alistic to expect to find a numerical method that offers a black-box type of numerical
method that is suitable for all these problems. A more reasonable approach is to
develop special numerical methods for specific classes of problems in order to take
advantage of the characteristic properties of these classes. These numerical methods
should then be decomposed into isolated and elementary partial problems. It would
then be possible to employ or develop efficient methods for these subproblems.

The fundamental aim of this book is to systematically develop the boundary ele-
ment methods for integral equations. These methods are developed for boundary
integral equations that result when elliptic boundary value problems on spatial
domains are transformed to integral equations on the boundary of the physical
domain. In this introductory chapter we will briefly describe the structure and
contents of this book.

1.1 The Concept of the Boundary Element Method

The boundary element method is a method for the solution of integral equations. In
this book we will restrict ourselves to integral equations for the solution of elliptic
boundary value problems. In order to offer a comprehensive description we will
introduce basic terminology and theorems from the theory of partial differential
equations and the integral equation method in Chaps. 2 and 3.

1.1.1 Basic Terminology

We consider the following problem. Our aim is to determine a physical quantity u
that depends on the spatial variable x € R¢. Here d denotes the spatial dimension.

S.A. Sauter and C. Schwab, Boundary Element Methods, Springer Series 1
in Computational Mathematics 39, DOI 10.1007/978-3-540-68093-2_1,
© Springer-Verlag Berlin Heidelberg 2011



2 1 Introduction
We call equations for u that contain partial derivatives

du

diu= —
" Bx,-

(1 <i < d) or partial derivatives of u of higher order partial differential equations.
Classical differential operators that contain partial derivatives of a function are the
gradient, divergence and Laplace operator. For this let u be a differentiable, scalar
function. Then the gradient of u is given by

gradu := Vu := (01u, dzu, ..., qu)7 .
The divergence of a differentiable vector field w is defined by
d
divw:=V.w =ZB,-W,-.
i=1
If u is twice differentiable the Laplace operator can be defined:
d
Au = Z u.
i=1
It is easy to verify that
Au = div grad u.
For a differentiable vector field u : R3 — R3 the curl operator is given by
curlu:=V xu:= (321/13 — 03Uy, 03u; — 01us, O1Uz — 32u1)T .

Definition 1.1.1. A subset @ C R¢ is a domain if it is open and connected.

The domain €2 is called a normal domain if the Gaussian integral theorem holds.
Sufficient conditions can be found in, for example, [246], [128, Chap. 4], [142].

Theorem 1.1.2 (Gauss’ Integral Theorem). Letr Q2 C RY be a normal domain
with boundary 32, let n : Q2 — RY denote the exterior normal field and let
U D Q denote an open subset of R%. Then for every continuously differentiable
vector field v: U — R4:

/divv(x)dx:/ (v(x),n(x)) dsx.
Q Elo)
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1.1.2 A Physical Example

We consider the following physical problem. Find the fields E, D in the domain R3
which are characterized by the Maxwell equations:

curlE = 0, (1.1)
divD = p, (1.2)
D = ¢E, (1.3)

where € denotes the electrostatic permeability and p the electric charge density. In a
vacuum we have, for example:

-9

g=¢g = 6 Farad/meter.
b4

The quantity E : R3>—R3 denotes the unknown electrostatic field and D:
R3 — R3 the electrostatic induction. Equation (1.1) implies that there exists a
potential ® : R3—R such that

E = —grad ®. (1.4)
If we insert this into (1.3) we obtain

D = —ggrad ®.

Combining this with (1.2) yields a scalar equation for the potential ®:

—div(egrad®) = p (1.5)

in R3.
We now consider a conductor that is described by a bounded domain 27 C R3.
The complement or exterior domain is denoted by QT = R3\Q~. We assume

that the electrical permeability in 27 is given by a positive constant ¢~ and, in the
exterior Q 7, is given by a further positive constant 7. In the interior 2~ we obtain

the Poisson equation
A= nq (1.6)
e
and owing to p = 0 in the exterior of the conductor we obtain in QT the Laplace
equation, i.e., the homogeneous Poisson equation:

—AD = 0. (1.7)

Remark 1.1.3. Ifthe electrical permeability ¢ is only piecewise smooth but discon-
tinuous the assumptions in the definition of the divergence operator [see (1.5)] are
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generally not fulfilled. If we only consider the equation in the subdomains Q™ and
QT in which ¢ is smooth, applying the div-operator is not a problem.

Through the potential approach (1.4) we have reduced the stationary Maxwell
equations to a scalar differential equation. Since derivatives of second order do occur
but none of higher order, we are dealing with a scalar differential equation of second
order.

In order to find unique solutions for differential equations, we still need to pre-
scribe suitable boundary conditions. For example, for d = 2 the real and imaginary
part of any holomorphic function satisfy (1.7).

Example 1.1.4. For d = 2 the functionsu = l, u = x, u = y, u = x%— yz, u=
2xy, ... satisfy the Laplace equation. The functions can also be seen as functions in
R4 with d > 2 (constant in all further variables). They then also satisfy the Laplace
equation.

We assume that the boundary I of Q27 can be oriented and is sufficiently smooth
such that a continuous normal field n : I' — R3 can be defined. We assume that
n (x) points in the direction of the exterior Q. Using physical arguments (see
[138]) that are formulated in a mathematical manner in Sect. 3.3, we find that the
tangential component of the E-field and the normal component of the D-field are
continuous across the boundary. We will prove in Chap. 3 that under suitable condi-
tion the E and D-fields can be extended continuously (to one side) to functions E¥,
D : Q+t — R3and E~-, D™ : Q= — R3. Therefore the normal components of D
for x € T can be defined by

DS () ={nx),D" (x)), D, (x)=(n(x),D” (x))
and the tangential components by
E (x) =n(x) xE' (x), E; (x) =n(x) xE™ (x).
The transmission conditions are given by
Ef (x) =E; (x), Df (x) = D, (x) vx eT.
We now insert the potential approach (1.4) into these conditions. Note, however,

that the approach (1.4) only determines the potential uniquely up to a constant. It
can be chosen such that the transmission conditions for the potential ® are given by

ot (x) = & (x) (1.8)
oo+ Rl
8+a—n (X) = S_W (X) (19)

for all x € I". The quantity 8%—?: is called the potential flux. Conditions (1.8) and (1.9)
imply that the potential and the potential flux are continuous across the boundary I'.
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In summary, we have derived the equations:

—ADP™ = 8% in Q
—ADt =0 inQ*t (1.10)
dt =P andet 831>+ =& 331: onT

for the electrostatic potential. These equations do not necessarily have a unique
solution.

Example 1.1.5. Let Q~ be the ball in R3 with radius 1 around the origin. In (1.10)
we choose p = —12 ||X|| as the right-hand side. By introducing three-dimensional
polar coordinates we can show that all functions of the form

_ 1 3+¢ta _ _
o (x):g—_(||x||3+w+a(e — &%) + be —4)

T (x) = L 4+ b
[

satisfy (1.10). If we impose the condition that ® be regular at the origin we obtain
a = —3/eT and we obtain the single-parameter family of solutions:

3
o~ (X) — lIx["—1 _ 5% + b7

1=
(1.1D)
ot (x) = —%”X” + b.

In order to guarantee the unique solvability of partial differential equations on
unbounded spatial domains we still need to prescribe suitable decay conditions
at infinity. For the Laplace equation and spatial dimension d = 3 these can be
written as

[@F @[ < C x|

Jerad ot (o < C 2§ o X (1.12)

In the case of the solution of Example 1.1.5 we obtain b = 0 as well as the unique
solution R

B - F <t
P (x) =

__3
Il x|l > 1.

Differential equations that are posed on all of R? are called full space problems.
One also often considers differential equations on bounded domains & C R3. For
example, if one is only interested in the electrical field inside the conductor Q7 the
differential equation (1.6) is only considered in the domain 2~. In place of the trans-
mission conditions (1.8) and (1.9) one now has to deal with boundary conditions
that can be obtained through physical measurements. If the potential is measured
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on I we speak of Dirichlet or essential boundary conditions. The associated interior
problem reads
—ADPT =p/e” inQ7,

1.13
®" =gp onl. ( )

If the fluxes are measured on I' we speak of Neumann or natural boundary condi-
tions. The interior problem reads

) —_ACD_ =p/e” inQ7, (1.14)
e dd /on=gny onT.

In the case of Neumann boundary conditions the right-hand side p/¢ has to sat-
isfy suitable compatibility conditions. These can be obtained by integrating the
Poisson equation (1.6) over 2~ and by then applying Gauss’ integral theorem
(Theorem 1.1.2) to grad @

/gdx:—/ACD(x)dxzfasz%;:(X)de-

It follows that the compatibility condition

[ 2%ax— [ 2 was.

which links the right-hand side in (1.6) with the given Neumann data gy, is neces-
sary for the solvability of the Neumann boundary value problem.

The exterior problems can be formulated in the same way. The Dirichlet exterior
problem consists in solving the problem

—A®T = p/etT inQT,

1.15
&t =gp onT (1.15)
and the Neumann exterior problem reads
_ Aq;-i— — + 3 Q-i-’
p/e™ in (1.16)

+q’ =gy onl.

As with the full space problem, suitable decay conditions have to be imposed at
infinity to guarantee the unique solvability. For spatial dimensions d = 3 these read

lu(x)| = O (1/ [x]), for [x|| = oo,

1Vu) = 0 (IxI72) for x| — oo. 1
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1.1.3 Fundamental Solutions

It is our aim to transform the boundary value problems from the previous section into
an integral equation on the boundary I' := 92~ and only then solve it numerically.
To transform a partial differential equation into an integral equation one needs the
fundamental solution of the underlying differential operator. We again consider the
Poisson equation:

—rp=" (1.18)
&
in R3. The function
_ p(y)
N (x) = G (x—y) —=dy (1.19)
R3 &
with the kernel function
G(z) = (1.20)
47 ||z

is called the Newton potential and the function G from (1.20) is called the funda-
mental solution or the singularity function for the Laplace operator (for d = 3). The
Newton potential exists for all functions p € C° (R?) with compact support and
solves the Poisson equation. For a proof we refer to [115, Chap. 17, Theorem 2].
The fundamental solution satisfies the Laplace equation in R3\ {0}:

AG =0 inR*{0}. (1.21)

More specifically, we have, in the sense of distributions, the equality AG = §
on R3 with the delta distribution 8 at the point zero. These and further properties
of the fundamental solution and of the Newton potential are discussed in Chap. 3.

1.1.4 Potentials and Boundary Integral Operators

The boundary element method can be applied especially efficiently to homoge-
neous boundary value problems. If the equation is inhomogeneous the problem can
transformed into a homogeneous problem by using the Newton potential. Since eval-
uating the Newton potential at one point X requires an integration over Q (or %),
the method becomes very expensive if p has a large or, in the most extreme case,
unbounded support. For this reason we will generally assume that the inhomoge-
neous part p has compact support: suppp CC R3. It can be shown under these
conditions that the Newton potential always satisfies the decay conditions (1.17)
(see Chap. 3).

The Newton potential solves the Poisson equation. In general this potential will
not satisfy the boundary conditions or the jump conditions. It only represents a spe-
cial solution of the problem with which the Poisson equation can be transformed
into the Laplace equation. All solutions of the Poisson equation can be written as
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the sum of a special solution and a solution of the homogeneous problem
® =N + . (1.22)

We will first consider the exterior problem with Dirichlet boundary conditions (1.15)
and decay conditions (1.17). Evaluating N at one point X requires an integration over
the unbounded exterior domain Q.
The principle of superposition implies that @ is the solution of the Laplace
equation
Ady =0, inQt,
P9 =¢gp onT,
lu(x)[ =0
[Vu )| = 0 (||x||‘2)§ for Ixlh = e

with the modified boundary conditions gp = gp — N |r. With the help of the
fundamental solution we can define an approach for x € R3\I" which reads

(1.23)

D (x):/FG(x—y)o(y)dFy. (1.24)

The function ¢ : I' — C has not yet been determined and is called densiry. For
continuous densities 0 € C? (") the integral in (1.24) exists as a Riemann integral.
The right-hand side of (1.24) defines the single layer potential S (o) of the density 0.
Since x € R3\I" and y € T the differentiation and integration commute and with
(1.21) we obtain:

AS (o) =0

in R3\I'. We will show in Chap.3 that S (o) satisfies the decay conditions (1.23)
for every 0 € C?(T"). The problem (1.23) has thus been solved [and with it so has
the initial problem (1.15)] if the density o can be determined in such a way that the
boundary conditions @y |r= gp are satisfied. It will be shown in Theorem 3.1.16

that the single layer potential S (o) can be continuously extended across the surface
I" by

V(a)(x)z/FG(x—y)a(y)dF, forx € T. (1.25)

Thereby, the integral for 0 € C°(I") in (1.25) exists as an improper Riemann
integral. The boundary integral equation to determine the density o then reads:

V(o) =¢gp, onT, (1.26)

or explicitly:

[ W) r —epx).  forallxeT.
r4rm|x—y|
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Note that this integral equation represents a boundary integral equation, as we have
x,y € I and the functions o and gp are mappings from I" to C. Integral equa-
tions where the unknown function only appears under the integral are called integral
equations of the first kind. The idea is based on the fact that the approach (1.25) sat-
isfies the differential equation in Q™ for all densities. This approach for the solution
of a differential equation is called the potential approach method or the indirect
formulation.
As a generalization of this approach we note that every derivative of the form

k(Xy) =) o) RHG (x—y)
v,

satisfies the Laplace equation Ak (x,y) = 0 forx € Q1 and y € T and therefore
also the potential formed with k.

We will introduce the double layer potential for the interior problem with Dirich-
let conditions. Once again the Poisson problem can be transformed into the Laplace
equation by using the Newton potential:

Ady =0in Q7,
Py =gponl

with gp = gp — N |r. We set

(n(y),y—x)

Koy = WG x-y)=="/5 =5

1.27)

and with this we form the double layer potential
D (0) (x) := / k(x,y)0(y)dly forall x € R3\T.
r

Again, forx € R3\I" and y € T the differentiation and integration commute and we
obtain AD () = 0in Q. If the unknown density 6 : I' — C can be chosen such
that
lim D (0) (x) = gp (Xo), forallxg € T’ (1.28)
X—>X(

then ® = N + D () solves the interior problem (1.13). We will show in Chap. 3

that D (0) can be extended continuously from the interior to the boundary. The
extension has the following representation for sufficiently smooth boundaries:

—%e(x)+K(9) ®  xeT (1.29)

with the boundary integral operator [k as in (1.27)]



10 1 Introduction

K (0) (x) := [Fk (x,y) 6 (y)dTy, forallx € T (1.30)

If we insert the representation (1.30) into (1.29) and then into (1.28) we obtain the
boundary integral equation

—%9 x)+ K () (x)=¢gp (x), forallx e T (1.31)

in order to determine the unknown density 8 : I' — C. The integral equation (1.31)
is defined on I" (x,y € T" and 0,gp : ' — C) and, thus, is again a boundary
integral equation. Since the unknown function 8 appears in the integrand as well as
outside of the integrand, (1.31) is called a boundary integral equation of the second
kind.

If the surface is sufficiently smooth the integral in (1.30) exists as an improper
Riemann integral.

In Chap.3, we will present further possibilities of transforming even more
general elliptic differential equations with more general boundary conditions into
boundary integral equations.

1.2 Numerical Analysis of Boundary Integral Equations

In Chaps. 4-6, we will deal with the numerics of boundary integral equations. Pri-
marily, we will consider Galerkin boundary element methods for the discretization.
Alternatives, such as collocation methods, are considered in examples.

1.2.1 Galerkin Method

In Chap.4 we will consider the Galerkin boundary element method in its original
form.

The basis of the Galerkin method is a finite-dimensional subspace S of the
function space H which contains the continuous solution of the boundary integral
equation. As an example we consider the boundary integral equation (1.26) for the
single layer potential. The construction of the boundary element space S is based
on a decomposition of the boundary I' of € into non-overlapping panels which
defines the surface mesh G of I'. For a panel 7 € G, b, : ' — {0, 1} denotes the
characteristic function on z. The space S is the span of the basis functions (b;) g

S :=span{b; : T € G}. (1.32)
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The dimension of S is denoted by N := dim S. Every function o € S is uniquely
determined by the coefficient vector (07),¢g € RV with respect to the basis
representation 0 = Y . 07by.

Usually one cannot expect the boundary integral equation (1.26) to have a solu-
tion in S. Since every function in S is determined by N degrees of freedom,
in general only N conditions can be imposed to determine the coefficient vector
(Ur )reg-

For the Galerkin method (1.26) is multiplied by the basis functions b, and then
integrated over the boundary I". The equations to determine the Galerkin solution
then read: Find og € S such that

a(os,by) = /1“ V (os) beds = [ngbfds =: F (by) Vteg. (1.33)

It will be shown in Chap. 4 under which conditions the results on existence and
uniqueness for the continuous boundary integral equations can be transferred to the
Galerkin equations.

Questions concerning convergence and convergence rates are just as important
for the evaluation of the method. We will show that under suitable conditions for
a sufficiently fine surface mesh G the Galerkin solution converges quasi-optimally:
There exists a constant C which is independent of the right-hand side such that

lo —os||g < Cdist(o,S) with dist(o,S) := elng lo—6lg (1.34)
€

holds. The quantity dist (o, S) depends only on the regularity of the solution o, the
chosen norm ||-|| z and the boundary element space S.

The quasi-optimality of the Galerkin method, i.e., the error estimate (1.34), is
proven under suitable conditions in Chap. 4.

In order to estimate the quantity dist (o, S), the regularity of the continuous solu-
tion o has to be analyzed. Depending on the smoothness of the boundary I' and the
right-hand side gp it can shown that the solution 0 € H lies in a smoother space
W cCH.

We use the dimension N of the boundary element space as a parameter to
describe the rate of convergence. We would like to estimate the quantity dist (o, S)
depending on N. The regularity of the solution combined with the approximation
property of the boundary element space leads to the error estimate

dist (0, 5) < CN ™ |lo |y ,
where @ > 0 denotes the rate of convergence, which depends on W and S. In

summary, we obtain
lo—oslly < CN o]l - (135)
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1.2.2 Efficient Methods for the Solution of the Galerkin
Equations

The Galerkin solution is entirely defined by (1.33). However, these equations do
not offer a clear idea of how to solve them efficiently. Since on the computer it is
not possible to work with continuous (boundary element) functions but only real
numbers, we transform (1.33) into a linear system of equations for the coefficient
vector (0¢),¢g- If we insert the ansatz

os =Y och: (1.36)

€@

into (1.33) and use the linearity of the operator V' we obtain

Za,/ V(b,)b,ds:/gpb,ds Vreg.
r r

teg

We define the system matrix V := (Vi) ;g by Vrr 1= Jr V (bs) brds for z,
t € G and the vector g := (8:),¢g by 8 := [ §pb-ds for all T € G and obtain a
linear system of equations for the coefficient vector (07) ;g

Vo =g. (1.37)

The Galerkin solution o results from the vector o through (1.36). In order to
evaluate the Galerkin solution efficiently, it is thus necessary to develop quadrature
methods, specifically designed for each problem, to determine the entries of the
system matrix as well as fast methods to solve the system of equations.

1.2.2.1 Quadrature Methods

In the case of the basis functions b, from (1.32) the matrix entries for V are defined

by the integrals
1
Vo= —————dsxdsy. 1.38
o= [ oyt (39

For v = ¢ these integrals are singular for x = y and special quadrature methods have
to be developed to approximate them. These consist of a combination of regularizing
coordinate transformations and Gaussian quadrature formulas. We will illustrate the
idea of coordinate transformations by using the simple example of the integration of
an integrand with characteristic singular behavior over the triangle with the vertices
0,07, (1,0)T, (1. DT
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1 X1
I = / / S O, %) dxdx.
o Jo

/2 2
X1+X2

The transformation (£1, 1) = (11, n112) maps the (11, 2)-coordinates of the unit
square (0, 1) to the triangle 7. From this and with the determinant of the Jacobian
detJ (n1,712) = 11 we obtain the representation

1 1 1 1
b 17
1 =/ / Ul—f (Zl mzzid'lzdﬂl =/ S (1. mna) UIZZ)dﬂzdm.
070 \ni+mim VAR

The integrand in the last integral is smooth for smooth functions f and the integral
can be approximated by using Gaussian quadrature.

In Chap. 5 we will generalize these Duffy coordinates (see [83]) to pairs 7 x t of
panels.

The approximation of the entries of the system matrix by means of quadrature
methods leads to a perturbed linear system of equations

Ve =g (1.39)

as well as a perturbed Galerkin solution s = s 6:b;. The consistency and
stability analysis of this perturbation allows us to choose the order of the quadrature
such that the order of convergence « in (1.35) of the unperturbed Galerkin solution
is maintained. In the second part of Chap. 5 this influence will be analyzed.

1.2.2.2 Solving the Linear System of Equations

In Chap. 6 we will study efficient methods for the solution of the linear system of
equations (1.39). We will also analyze their convergence.

For a large dimension N = dim S of the boundary element space, methods such
as the LR decomposition cannot be considered as their complexity grows in cubic
proportion to the dimension N . Instead, iterative methods are used. The convergence
of classical iterative methods is determined by the condition of the matrix V. The
integral equations under consideration can be divided into three types:

1. Equations with non-symmetric system matrices and a bounded condition number.

2. Equations with symmetric, positive definite system matrices and a condition
number that grows as N /2 in proportion to the dimension N of the boundary
element space. The underlying boundary integral operator is smoothing, i.e., the
order of differentiability of the image of the function is one order higher than that
of the function itself.

3. As in (2) but the boundary integral operator has differentiating properties, i.e.,
the order of differentiability of the image of a function is one order lower than
that of the function itself.
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For systems of equations of type 1 minimal residual methods — these are vari-
ants of the cg-method for non-symmetric matrices — can be used. The number
of iterations necessary to reach a prescribed error tolerance is independent of the
dimension N.

For systems of equations of type 2 and 3 the cg-method can be used. We will
show in both cases that the number of iterations to reach a prescribed error tolerance
grows as N '/# in proportion to the dimension of the system of equations.

Since the equations of type 3 have a differentiating effect they are closely related
to Finite Element discretizations of elliptic boundary value problems. The multi-grid
methods that are used in connection with these discretizations can be generalized for
boundary integral equations of type 3. We will prove in Chap. 6 that the number of
multi-grid iterations needed to reach a prescribed tolerance is independent of N.

1.2.2.3 Cluster Method

The complexity for the solution of the linear system of equations (1.37) with an
iterative method is the product of the number of iterations and the complexity
per iteration. If the iterative methods from Chap. 6 are used we face the follow-
ing dilemma. The number of iterations is essentially independent of the dimension
of the system of equations; however, the complexity per iteration grows quadrati-
cally with respect to N. This is due to the fact that the system matrix for integral
operators is generally dense [see (1.38)].

In Chap.7 we study the cluster method, with which a matrix-vector multi-
plication can be approximated and the complexity of which is proportional to
O (N log“ N) for k ~ 4 to 6. Closely related to the cluster method is the fast multi-
pole method (FMM) which was originally developed for N -body particle problems
(see [111,193]). We will briefly discuss this method in Chap. 7 as well.

We will explain the idea of the cluster method by using a simple model problem.
For this purpose we assume that the kernel function is degenerate, i.e.,

k(x,y) =) & (x) ¥ (y) (1.40)
i=1

for suitable functions (®;)/~, and (¥;)/, with m <« N. Then the coefficients of
the system matrix of the associated boundary integral operator are given by

Voo = /I‘ /I‘k (X, y) br (x) by (y) dsxdsy
-3 (fombwas)([wmnmas).

Although this matrix is also dense in general, it can however be stored by using
O(N) quantities and it can be multiplied by a vector with a complexity of O (N)
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arithmetic operations. For this we define the coefficients

Li: ::/CD,- (x)br (x)dsxy and R :=/\IJ,- (y) b (y) dsy
r r

VtegG V1I<i<m.

Since the support of the basis functions b, only consists of the panel 7, the integra-

tion over I' can be reduced to the panel t. If the functions ®; and W; are sufficiently

smooth the assumption that every one of the numbers L; ., R; ; can be evaluated

with a complexity of O (1) arithmetic operations, independent of N, is justified.

The overall complexity for the computation of all quantities is then given by O (N).
One matrix-vector multiplication # = Vo can then be evaluated as follows:

1. Determine the auxiliary quantities y; := Zreg R; 0. for 1 <i < m with an
arithmetic complexity of O (N) operations.

2. Determine 6 as given by 0, := Y i, y;L; ; forall T € G. Complexity: O (N)
arithmetic operations.

In the context of iterative methods to solve linear systems of equations it is often
sufficient to have a subroutine at your disposal that evaluates a matrix-vector mul-
tiplication. Furthermore, only O (N) matrix entries have to be stored (for example,
the diagonal elements for the Jacobi method). We have thus shown that for degen-
erate kernel functions it is sufficient to compute O (N) real numbers in order to
evaluate one matrix-vector multiplication with a complexity of O (N).

We would like to emphasize at this point that the kernel functions for integral
equations are generally not degenerate, but the approach (1.40) has to be general-
ized. The matrix-vector multiplication is, in the general case, only approximated
and the influence of this additional perturbation on the Galerkin solution will also
be analyzed in Chap. 7.

1.2.2.4 Surface Approximation

In practical applications, the description of the “true” physical surface might be
very complicated or even not available as an exact analytic function and has to
be approximated by using, e.g., pointwise measurements of the surface or some
geometric modelling software. In this introduction, we illustrate the concept by the
example of the first kind integral equation for the single layer potential on a smooth
surface I in R3.

The construction of an approximate surface starts with definition of an interpolat-
ing polyhedron Q" with surface "¢, Let Gafine — {rffﬁ"e, .. rg;ﬁ“e} denote a
surface mesh of ['*f" consisting of plane triangles with straight edges rffﬁ“e which
interpolate the exact surface I' in their vertices. The affine pullback of "¢ ¢ Gaffine
to the two-dimensional reference triangle 7 with vertices (0,0)7, (1,0)7, (1, 1)T is
denoted by yifire : ¢ — gafine et P U — T denote the orthogonal projec-
tion of a sufficiently small neighborhood U C R3 of T'. A surface mesh for I is
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then defined by G = {P (rafﬁ“e) . gaffine o gafﬁne}. The pullbacks of T € G to the
reference element is given by y, := P o ydffine,

In principle, the Galerkin boundary element method can be applied directly to the
surface mesh by defining the boundary element spaces with respect to G. However,
the mapping P is in general complicated and non-linear or even available only by
pointwise measurements and hence must be approximated and realized by numerical
approximation.

The p-parametric surface approximation is defined by replacing the mapping y.
by an (componentwise) interpolating polynomial y,, of degree p and approximat-
ing the panels t € G by y. ,, (). (Note that for the definition of the interpolating
polynomial y,, only the evaluation of P at the interpolation points are required and
not its functional representation.) This leads to the mesh G7 := {y.,, () : T € G}
and the approximate surface

re.=(Jr.
TEGP
The corresponding piecewise constant boundary element space is S, := span

{b; : T € GP}, where b, : TP — R is the characteristic function for 7 € G?. The
Galerkin method with piecewise constant boundary elements and p-parametric sur-
face approximation for the single layer equation (1.26) is given by: Find ag’ €S,
such that

p

/ s Wbe &) 4 s, :/ gBbeds  VregPl (1.41)
rexre 47 [x—y| e

Here, gg is some extension of gp in (1.26) to I'?, e.g., by polynomial interpo-

lation. From the numerical point of view, the problem is substantially simplified

because the parametrization of I'? is explicitly given by polynomials instead of the

complicated projection P.

In order to compare the solution 05 with the continuous solution ¢ for the error
analysis we have to lift Oé’ to the original surface I'. For sufficiently small mesh
width 7 := max {diamt : t € G}, we assume that the restriction P : ['? — T is
bijective and set 7 = ( P |Fp)_1. Let 6 := 0¥ o 67 denote the Galerkin solution
which is lifted to the surface I" so that the error o — 6§’ : I' — C is well defined. For
the error analysis it is convenient to rewrite (1.41) equivalently as a problem on the
true surface T'. For this, let S, := {0 007 : 6 € S} denote the lifted boundary

element space. Then 6§ € S p s the solution of

~D
X N oy (y) bz (x) » »
aS (US’bT) T LXF A7 ”91; (X) —Qr (y)”p (y)p (X) dSdex
- [Fggb;pl’ds = Fl (b;) Vied, (1.42)

where grg = gg 00P? and p? : ' — R reflects the change of metric. For any 7 € G
it is defined by
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-1
PP\, = % with g, = \/det ((Dy<)" Dyz) and
T T

8up = \/det ((D)(r,p)T D)(r,p>.

For the error estimates, one has to compare the bilinear forms and right-hand sides
in (1.33) and (1.42) and estimate the quantities 8! and §" in

ja (@, v) —a§ )] <8 ulg Vg Vu.ve S,
|F(u)—F§’(u)|§5H |l g Yu e Sp.

To keep this outline short, we assume that the error related to the right-hand side van-
ishes, i.e., 8 = 0. The estimate of §' can be derived from stability and consistency
estimates of the form

1 1 C 1 C
- < AR = ,
Ix—=yll 167 &) =67 M|~ Ix—yl 167 (x) =607 W ~ lIx—yl

|p? (y) — 1| < ChP*1, lp? (y)| = C.
(1.43)
These estimates and similar estimates for more general kernel functions and also for
only piecewise smooth surfaces will be derived in Chap. 8. It will also been shown
that (1.43) implies 8 < Ch?*! and in the case of full regularity of the solution &
we get

o =581, = Co (W2 + 1741

This allows us to conclude that, for the boundary integral equation for the single
layer potential on a smooth surface discretized by piecewise constant boundary ele-
ments, the approximation of I' by an interpolating polyhedron, i.e., p = 1, suffices
in order to preserve the convergence rates of the original Galerkin discretization.

1.2.2.5 A Posteriori Error Estimation

The a priori error analysis of Galerkin boundary element methods shows the asymp-
totic convergence rate of the Galerkin solution by combining (a) the discrete stability
of the variational formulation, e.g., in the form of an ellipticity estimate with (b) the
regularity analysis of the continuous solution, e.g., by analyzing the smoothness of
the solution in dependence of the smoothness of the given data, and (c) approxi-
mation properties of the boundary element functions for functions which belong to
the regularity class of the exact solution. These estimates can be applied to large
(infinite-dimensional) problem classes — however they might be very pessimistic
for the concrete problem under consideration. In practical applications, the typical
question is to “compute a numerical solution to a prescribed accuracy with minimal
cost”. However, the exact discretization error is not available in general because it
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requires the knowledge of the exact solution. Hence the only way to guarantee a
prescribed accuracy of the numerical solution is to estimate the error theoretically
by quantities which are computable. Since the upper bounds in a priori estimates, in
general, are by far too pessimistic and various constants appearing therein cannot be
estimated in a sharp, problem-dependent way, the condition: “refine the boundary
element space until the upper bound becomes smaller than the given error toler-
ance” is not practicable because it exceeds the capacities of modern computers as a
consequence of these pessimistic estimates.

The a posteriori error analysis allows us to estimate the error by some quanti-
ties (denoted as error indicators and error estimators) whose computation uses the
computed numerical solution and hence is adapted to the concrete problem under
consideration. The advantage is two-fold: (a) the estimates are sharp and can be
used to guarantee a prescribed accuracy requirement and (b) the local error indica-
tors provide information concerning the local error distribution and can be used to
enrich the boundary element space in an adaptive solution process.

In order to explain the principal idea we consider again the Galerkin dis-
cretization (1.33) of the single layer potential. For the error es := 0 — os we
obtain

lo—osllg =[V='V (e ~0s)|4 = Cv V(e —0os)lua=Cy I&p —Vos|g -
(1.44)

Here H is the infinite-dimensional space in which the continuous problem is for-
mulated and V : H — H' is the boundary integral operator associated to the single
layer potential. H' is the dual space of H and

_ -1

L
is the continuity constant of the inverse operator V ~!. Note that (1.44) contains
the right-hand side gp as in (1.26) and the numerically computed solution og but

not the exact solution. For the operator V' the norm in the space H' is given for
w € H' by

. 2 2
Il 2= 122y + Il r

{'W””m*/ . |W(T>)<:;V||(y)| sy

1/2

which is denoted as the Sobolev norm of fractional order 1,/2. The goal is to estimate
the |||l 7, p-norm of the residual r = gp — Vos [cf. (1.44)] and use this as a bound
for the discretization error. To get local insights on the error distribution, it will also
be important to estimate ||7 || g by a sum of local error indicators. For this, let 7
denote the set of counting indices of the basis functions b;, i € Z, for the boundary
element space S and let

w; = supp b;
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denote their support. Then we will show that

Cesr anz <|lo—osllg < Cri anz where ;= |r|gs - (1.45)
Viez VieI

A posteriori error estimators which satisfy the upper estimate in (1.45) are called
reliable and if the lower estimate is satisfied they are called efficient. These estimates
require the localization of the integral [ . in the definition of the fractional order
Sobolev norm to a sum of integrals over [ P It is relatively simple (but technical)
to prove that
Whre = D W +C D7 IVl
ieT T€g

Hence it remains to estimate

he V220 < C IV 0, » Where @ := _U¢t. (1.46)
teGtNT#D

Unfortunately, this estimate cannot hold for all functions v € H’ as can be eas-
ily seen by considering the function v = 1. However, for functions which satisfy
a certain orthogonality relation with respect to the boundary element space, esti-
mate (1.46) can be proved. Furthermore, we will prove that the residual r satisfies
this orthogonality relation and hence the reliability of the error estimator can be
concluded.

Notation 1.2.1. Throughout the book C and ¢ denote generic positive constants
which may vary from inequality to inequality.






Chapter 2
Elliptic Differential Equations

Integral equations occur in many physical applications. We encounter some of the
most important ones when we try to solve elliptic differential equations. These can
be transformed into integral equations and can then be solved numerically by means
of the boundary element method. The subject of this chapter is the formulation and
analysis of scalar, elliptic boundary value problems.

2.1 Elementary Functional Analysis

In this chapter we will present a few fundamental results from functional analysis
that we will need at a later stage. It is not intended as an introduction to functional
analysis; instead we will refer to other textbooks or we will give schematic proofs if
we think this might help the reader’s understanding of the subject. The presentation
is based on the book [115, Chap.6]. A detailed introduction to linear functional
analysis can be found in, e.g., [3,62,98, 195,243].

2.1.1 Banach and Hilbert Spaces

2.1.1.1 Normed Spaces

We denote by X a normed, linear space over the coefficient field K € {R,C}. A

norm || - || : X — [0, co) is a mapping with the properties
VxeX:|x|=0=x=0, (2.1a)
VA eK: |Ax]| = |A] x|, (2.1b)
Vx,y e X :lx +yll < llxl + lIyll- (2.10)

We will use the notation ||-|| x if the space X is not clear from the context. We call
the pair (X, || - ||) a normed space.

S.A. Sauter and C. Schwab, Boundary Element Methods, Springer Series 21
in Computational Mathematics 39, DOI 10.1007/978-3-540-68093-2_2,
© Springer-Verlag Berlin Heidelberg 2011
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With || - ||x we have defined a topology on X: a subset A C X is open if there
exists a constante > 0 forall x € A suchthattheball{y € X : |[x—y|x <&} C A.
For a sequence (x,), C X we write x, — x if

x = lim x, <= lim |x —x,||lx =0.
n—oo n—oo

Remark 2.1.1. Every norm || - || : X — [0, 00) is continuous since we have from
(2.1c) the reverse triangle inequality

Vx,y e X lxl =yl < llx =yl 2.2

We can define several different norms on X. Two norms | - ||1, || - ||2 on X are
equivalent if and only if

IC>0: C7lx|, <lxll, =C x|, Vx e X. (2.3)

Equivalent norms induce the same topology on X .

2.1.1.2 Linear Operators
Let X and Y be normed spaces with the respective norms || - ||x and || - ||y . A linear
mapping 7 : X — Y is called an operator. An operator 7 : X — Y is called
bounded if

IT|ly<x = sup {|ITx|y/llxllx : 0# x € X} <oo. (2.4)

Here || T ||y —x is the operator norm. The set of all bounded linear operators 7" :
X — Y is denoted by L (X, Y) and together with

(T + T2)x :=T1x + Tox, (ATy)x = T1(Ax), A € K, 2.5)

constitutes a normed, linear space (L(X,Y), || - ly<x).- If X = Y we write L(X)
instead of L(X, X). L(X) is an algebra if we set

VT1,T, € L(X,X) : (T1T2)x = T](sz).
For a normed space X, Ix € L (X) denotes the identity on X. A mapping 7! €

L (Y, X) is the inverse of the mapping T € L (X,Y) if we have TT~! = Iy and
T7'T = Ix.

Exercise 2.1.2. (a) Show that forall x € X and T € L(X,Y) we have

ITxlly < ITlly<x|xlx- (2.6)



2.1 Elementary Functional Analysis 23
(b) Show that for Ty € L(Y,Z), T, € L(X,Y) we have T1 T, € L(X, Z) and
IT1 T2l zex < [Tillz<y IT2]ly «<x- 2.7
Definition 2.1.3. The sequence (7,), C L(X,Y) convergesto T if
T, > T << |T —Ty|lyex — 0 for n — oo.
It converges pointwise to 7 if

VxeX: |Tux —Tx|ly = 0 for n — oo.

2.1.1.3 Banach Spaces

The sequence {x,} C X is called Cauchy sequence if sup{||x, — xm|x
n,m >k} — 0fork — oco. X is called complete if all Cauchy sequences converge
to an x € X. A complete, normed, linear space is called a Banach space.

Proposition 2.1.4. Let X be a normed space and Y a Banach space. Then L(X,Y)
is a Banach space.

Proposition 2.1.5. Let X be a Banach space and Z C X a closed subspace. The
quotient space X/Z consists of the classes X == {x +z :z € Z} forall x € X.
The quotient space X | Z with the norm | X|| := inf{||x + z||x : z € Z} is a Banach
space.

We call the set A C X dense in X if we have for the closure A = X. More
specifically, this means that for all x € X there exists a sequence (x), C A with
Xn — x.If (X, ||-||x) is normed but not complete then the Banach space (X Il ||X)
is the completion of X if X is dense in X, X is complete and we have | x|z =
|x||x forallx € X.

The Banach space X is called separable if there exists a countable, dense subset
A={an:neN}CX.

The completion X is unique up to isomorphism. The continuous extension of a
linear operator 7 € L(X,Y) from a dense subset Xo C X to X is also uniquely
determined. The following proposition explains this in more detail.

Proposition 2.1.6. Let X¢ be a dense subset of (X, | - ||x). An operator Ty €
L(Xo,Y) with
ITolly <xo = sup{lToxlly /lxllx : 0# x € Xo} < o0

has a unique extension T € L(X,Y) that satisfies the following conditions:

1. Forall x € Xog we have Tx = Tyx.
2. For all sequences (xy), C Xo with x, — x € X we have Tx = limy—oc ToXy.
3 NTlly<x = [Tolly <x,-
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The following theorem and corollary are both a result of the open mapping
theorem (see [243, Theorem 6.6]).

Theorem 2.1.7. Let X,Y be Banach spaces, let T € L(X,Y) be injective (Tx =
Ty = x = y) and surjective (forall y € Y there existsanx € X withTx = y).
Then the mapping T~' € L(Y, X) exists.

Corollary 2.1.8. Let X,Y be Banach spaces and let T € L(X,Y) be injective.
Then the following conditions are equivalent:

(a) Yo :=1{Tx:x € X}with | - |y is a closed subspace of Y .
(b) T~ existson Yy and T~' € LYy, X).
2.1.1.4 Embeddings

Let X, Y be Banach spaces with X C Y. The injection (or embedding) / : X — Y
is defined by /x = x for all x € X and clearly is linear. If I is bounded, that is,

Vx e X : [lxlly =Clx|x, (2.8)
we have I € L (X,Y).If X is also dense in Y, we call X densely and continuously
embedded inY.
2.1.1.5 Hilbert Spaces

Let X be a vector space. A mapping (,-) : X x X — K is called an inner product
on X if

(x,x) >0 Vx e X\ {0}, (2.9a)
Ax +y,2) =Ax,2) + (y,2) VriekK, x,y,z€ X, (2.9b)
(x,y) =(y,x) Vx,y€eX (2.9¢)

A Banach space (X, ||:||x) is called a Hilbert space if there exists an inner product
on X such that || x|y = (x,x)l/2 forall x € X.
Furthermore, from (2.9) we have the Cauchy—Schwarz inequality

el < llxll iyl Yx.y € X. (2.10)

Two vectors x, y € X are orthogonal if (x,y) = 0. We denote this by x L y. For
ACX,At:={x e X |VYaecA:(x,a)=0}is aclosed subspace of X.

Proposition 2.1.9. Let X be a Hilbert space and U C X a closed subspace. Then
wehave X =U ® U2, ie.,
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VxeX:x=u+v,ucU veU?L, |x]|*> = |ul®+ |Iv|>

A system of orthonormal vectors (v f)j <7 in a Hilbert space X is an orthonormal
basis of X if, for every x € X, the Fourier expansion

X = Z(x,vj)vj

Jj€T
converges.
Theorem 2.1.10. For every Hilbert space, there exists an orthonormal basis.

A proof can be found, e.g., in [131, Theorem 65.1], [141].

2.1.2 Dual Spaces

2.1.2.1 Dual Space of a Normed, Linear Space

Let X be a normed, linear space over K € {R, C}. The dual space X’ of X is the
space of all bounded, linear mappings (functionals)

X' = L(X,K).
X’ is a Banach space with norm
x|+ := [1x[lkx = sup {|x"(x)| /lIx]lx : x € X\ {0}}. (2.11)
For x’(x) one can also write
(x, XV xxx = (', x)xxx = x'(x), (2.12)

where (-, ) xxx’, (", -) x'xx are called dual forms or duality pairings.

Lemma 2.1.11. Let X C Y be continuously embedded. Then Y' C X' is continu-
ously embedded.

Proof. Since X C Y, any y’ € Y’ is defined on X. We therefore have Y’ C X'.
Since X C Y, we have, due to (2.8),

1yl = sup {Iy')l/lIxlly} = C™" sup {[y'l/lxlx} =C7" 1y llx
xeY\{o} xeX\{0}

and therefore ||y’||x» < C|y’|ly’. This proves that the embedding Y’ C X’ is
continuous. O
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The bidual space X" of X is defined as
X" = L(X',K).

In general we have the strict inclusion X C X”. However, in many cases X is
isomorphic to X", i.e., every x” € X" can be identified with an x € X. We
write X = X”. In this case we call X reflexive. In particular, all Hilbert spaces
are reflexive.

2.1.2.2 Dual Operator

One of the most general principles in functional analysis is the extension of contin-
uous linear operators which are defined on some subspace of a Banach space to the
whole Banach space. We will need here the version of the Hahn—Banach extension
theorem in Banach spaces.

Theorem 2.1.12. Let X be a Banach space, M a subspace of X and fy a con-
tinuous linear functional defined on M. Then there exists a continuous linear
Sfunctional f defined on X such that (i) f is an extension of fo and (ii) || follcp =

I/ lcx-
The proof can be found, e.g., in [243, Chap. IV, Sect. 5].

Corollary 2.1.13. Let X be a Banach space and xo € X\ {0}. Then there exists a
continuous linear functional fo on X such that

Jo(xo) = lxollx and | follx = 1.
Proof. Let M := span {x¢} and define fy : M — R by
Jfo(axo) :=a|lxolly VaeC.
Then f is linear on M and | fo (exo)| = | [|Xo || x| = llaxo|lx. i-e., || follcear =1

Theorem 2.1.12 implies that there is a continuous linear functional f defined on X
such that

f@x)=/o(x) VxeM and |[flcex =lfollcem =1
O
Proposition 2.1.14. Let X, Y be Banach spaces andlet T € L(X,Y). Fory' € Y/,
(Tx,y)yxy = (x, X )xxx» VxeX (2.13)

defines a unique x' € X'. The mapping y' — x’ is linear and defines the dual oper-
ator T’ : Y’ — X' as given by T'y' = x'. Furthermore, we have T' € L(Y’', X')
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and
IT | x' <y = IT |ly—x- (2.14)

Proof. The relation given in (2.13) can be written as y'(T'x) = x'(x) orx’ = y’oT.
It follows from y’ € L(Y,K) and T € L(X,Y) that x’ € L(X,K) (Exercise 2.1.2).
From the defining relation (T x, y')y .y, = {x, T'y’) xxx» We obtain

T /,X ’ TX, ! ’
“T/y/| . = sup |( y )X ><X| = sup |( y )YxY |
xeX\{0} llx1l x xeX\{0} X[l x
ITx|ly
= ||y/|y/ sup _”y,|y/ ||T||Y<—X

vex\oy IXllx

Hence | T’ ||x'ys < |IIT|ly—x- The reverse inequality is proved next. Corol-
lary 2.1.13 implies that for any xo € X\ {0} there exists a functional fy € Y’
such that || follyr = 1 and fo (Txo) = (Txo. fo)yxys = IITxolly. Thus fg =
T' fo € X' satisfies

()C(), f0/>X><X’ = ”TXOHY

and so

ITx0lly = {x0. T" fo) s < [T [ 5y %0 llx I folly = | 7|

X/<Y’ ”xO”X .

Note that this estimate trivially holds for xo = 0. We conclude that | 7|y —y <
IT|| x'y- and (2.14) follows.
O

Conclusion 2.1.15. For two operators S € L(X,Y), T € L(Y, Z) we have:

(i) (TS)Y = S'T".
(ii) S is surjective =—> S’ € L(Y’, X') is injective.

Definition 2.1.16. Let X be a Banach space over Ke {R, C}. A function f:X — Y
is conjugate linear if

flau+pv)y=af ) +pBf v Vu,ve X anda, B € K.

2.1.2.3 Adjoint Operator
Let X be a Hilbert space over K € {R,C}. Forall y € X,
HO=06yx: X —>K

is continuous and linear. Thus we have fy(-) € X’ and | fy|lxx = ||ylx. The
converse is a result of Riesz’ theorem.
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Theorem 2.1.17 (Riesz Representation Theorem). Let X be a Hilbert space. For
all f € X' there exists a unique y f € X such that

Ifllx =1llyrllx and f(x)=(x,y5)x Vx € X.

Conclusion 2.1.18. Let X be a Hilbert space. We use the same notation as in
Theorem 2.1.17:

(a) There exists a bounded, invertible conjugate linear mapping Jx : X — X' with
IJxy = fy. Jx' f = yy. The mapping Jx is an isometry: |Jx|x'—x =
175  xx = 1.

(b) X' is a Hilbert space with inner product (X', y") x' := (Jx' X', Jx' y)x.

(c) |IX'lx in (2.11) is equal to (x', x’);(//z.

(d) X = X" with x(x") := x'(x) and we identify X with X". In particular, we
have Jx» = J3', Jx = (Ux), T" =T forT € L(X,Y)ifY = Y" and if
both are Hilbert spaces.

(e) If K = R, the spaces X and X' can be identified with each other by means of
the isomorphism Jx. Then we have X .= X' — Jx = 1.

(f) Let K = C. According to Theorem 2.1.10 we may choose a basis (v;);cr in X
and define the complex conjugation by

Cx ::f::Z(X,Vj)XVj (2.15)
jez

which satisfies C~' = C and C,C~' are conjugate linear isometries. Hence
Jx := JxC is an isometric isomorphism and we may identify any Hilbert space
with its dual by means of Jx.

Definition 2.1.19. Let X,Y be Hilbert spaces and 7 € L(X,Y). The adjoint
operator of T is given by T* := J5! T'Jy € L(Y, X).

We have

ITly«x = IT*|x<y and (Tx.y)y =(x.T*y)x VxeX,yeVY.
(2.16)

Definition 2.1.20.

(a) T € L(X) is self adjoint if T = T*.
(b) T € L(X) is a projectionif T2 = T.

Proposition 2.1.21. Let Xo C X be a closed subspace of the Hilbert space X . For
X € X there exists a unique xo(x) € X¢ with

[lx = xollx = min{[lx —yllx :y € Xoj. (2.17)

The mapping x — xo =: PXx is an orthogonal projection.
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Proof. Existence and uniqueness: The decomposition x = xo + x1, xo € Xp,
X € XOL is unique. We will show that y = x¢ minimizes the right-hand side in
(2.17). If we take x5 L (x¢ — z) into consideration, we have for every z € X

Ix = 2ll% = lIx — %0 + x0 — 2% = llx — xoll} —2Re (x — X0, %0 — 2)x + %0 — 2%
= [lx = xollx + llxo = 2l% = llx — xol% - (2.18)
This means that xo minimizes as required. The inequality in (2.18) only becomes an
equality for xo = z, which gives us the uniqueness.
Projection property: For x € X the first part of the proof implies Px = x and
therefore P2 = P.

Orthogonality: Let P* € L (X) be the adjoint operator of P. For x, y € X with
Xo := Px and yo = Py we have P = P*, since

(x. P*y)y = (Px,y)x = (x0.¥)x = (X0. Y0 + y1)x
= (x0,Y0)x = (xo +x1,y0)x = (x,Py)x.
The assertion follows from the fact that, for all y € X, we have

(x—Px,y)y =(x—Px,Py)y = (P*'x—P*Px,y)y
= (Px—sz,y)X =(Px—Px,y)x =0.

2.1.2.4 Gelfand Triple

In this section V' and U will always denote Hilbert spaces with a continuous and
dense embedding V C U.

Proposition 2.1.22. We have
U’ c V' is continuously and densely embedded. (2.20)

Proof. The continuity of the embedding U’ C V' follows from Lemma 2.1.11.
The fact that the embedding is dense follows from the auxiliary result: (U’)* = {0}
in V. In order to prove this we choose av' € V/\ {0} and setu := J;;'v e V. C U.
The function «’ := Jyu € U’ C V' satisfies u/(x) = (x,u)y forall x € U. By
choosing x := u = J;;'v' we obtain

Oy = 7 Iy = (T )y = ul(u) = (u,u)y > 0.

Therefore for all 0 # v € V’ there exists a u’ € U’ with («/,V')y+ # 0. From this
we have (U’)1 = {0} C V' and therefore U’ is dense in V. O
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We identify U and U’ (cf. Conclusion 2.1.18e,f) and obtain the Gelfand triple
VcUcV' (VcU continuous and dense). (2.21)

Proposition 2.1.23. In the Gelfand triple (2.21), V and U are also continuously
and densely embedded in V.

Remark 2.1.24. (a) In (2.21) one could also choose V- = V', which would result
inU cV' =V CcU. ForU # V itis not possible to set U = U’ and V =
V' simultaneously, as, for x,y € U, we would have x(y) = (y,x)uxy’ =
(y,x)u = (v, X))y, which is a contradiction for U # V.

(b) Since U = U’, (x, y)u can also be interpreted as (x, y)uxuv’. Forx € V C U,
we have y(x) = (x,y)yxyr = (x,y)y forally € U C V'. Since U C V'
is dense and continuous, (-, )y can be extended continuously to V x V' as the
dual form (-, )y xy’.

2.1.2.5 Weak Convergence

The Bolzano—Weierstrass theorem states that in K € {R,C} every bounded
sequence has at least one accumulation point. This statement only holds in a weaker
form when considering infinite-dimensional function spaces. First we will need to
define the concept of weak convergence.

Definition 2.1.25. Let B be a Banach space and let B’ be its dual space. A sequence
(1g)geny in B converges weakly to an element u € B if

Jim | @)= f ()lp =0 ¥feB.

Theorem 2.1.26. Let the Banach space B be reflexive and let (ug),cn be a bounded
sequence in B:

sup |lugllg < C < oo.
ZEN()

Then there exists a subsequence (ugj )jeN that converges weakly toau € B.

The proof can be found in, e.g., [141, V, Sect.7, Theorem 7], [131, Theo-
rem 60.6]. In order to distinguish the weak convergence of a sequence (uy),cpy tO
an element u from the usual (strong) convergence, we use the notation

Uy — U.

2.1.3 Compact Operators

Definition 2.1.27. The subset U C X of the Banach space X is called precom-
pact if every sequence (x),cyy C U has a convergent subsequence (xn l.)l. en: Itis
compact if, furthermore, x = lim; 00 X5, € U.
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Definition 2.1.28. Let X, Y be Banach spaces. T € L(X,Y) is called compact if
{Tx:xeX, |x|lx <1} is precompactin Y.

We will often consider operators that consist of several other operators.

Lemma 2.1.29. Let X,Y, Z be Banach spaces, let Ty € L(X,Y), T, € L(Y,Z)
and let at least one of the operators T; be compact. Then T = T,Ty € L(X,Z) is
also compact.

Lemma 2.1.30. 7 € L(X,Y) compact = T’ € L(Y’', X') compact.

Definition 2.1.31. Let Y be a Banach space and X C Y a subspace that is con-
tinuously embedded. The embedding is compact if the injection I € L(X,Y) is
compact. We denote thisby X CC Y.

Conclusion 2.1.32. X CC Y if every sequence (x;);ey C X with ||x;||x < 1 has
a subsequence that converges in Y .

Lemma 2.1.33. Let V C U C V' be a Gelfand triple and let the embedding V CC
U be compact. For T € L (V',V) the restrictions T € L(V',V'), T € L(U,U),
TeLWV, V), TeLV',U)andT € L(U,V) are all compact.

Proof. According to the assumptions the embedding / € L(V, U) is compact, and
therefore so is I € L(U, V') (see Lemma 2.1.30). T € L(U, V) is the composition
of the (compact) embedding I € L(U, V') with T € L(V’, V) and thus it is also
compact (see Lemma 2.1.29). |

Remark 2.1.34. For dim(X) < oo ordim(Y) < oo, T € L(X,Y) is compact.

The following lemma will be needed later for existence theorems when dealing
with variational problems.

Lemma 2.1.35. Let X C Y C Z be Banach spaces with continuous embeddings
andlet X CC Y. Then for all ¢ > 0 there exists a constant C; > 0 with

VxeX: |xlly =elxlx + Cellx|z.

2.1.4 Fredholm—Riesz—Schauder Theory

Let X be a Banach space and let T € L(X) be a compact operator. In the following
theorem we will establish the connection between the spectrum

o(T):={AeC:(T-A)"' ¢ LX)} (2.22)

and the eigenvalues of T'.
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Theorem 2.1.36. (i) For all A € C\{0} we have one of the alternatives
(a) (T — A1)~ € L(X) or (b) A is an eigenvalue of T.
The following alternatives are equivalent: (a') The equation

Tx—Ax=y

has a unique solution x € X forall y € X. (b') There exists a finite-dimensional
eigenspace

EQAT)=4{eX|Tv=Av}
VO#Axe E(A,T): Tx = Ax.

(ii) o (T') consists of all eigenvalues of T and it includes A = 0if T~' ¢ L(X, X).
There are at most countably many eigenvalues {A;} and the only possible
accumulation point is zero.

(iii) Aeo(T) < A ea(T). (2.23)

(iv) We have _
dim(E(A,T)) = dim(E(A,T")) < oco. (2.24)

(v) For A € a(T)\{0} the equation
(T—-A)x =y
has at least one solution if and only if the compatibility condition
(y.xVxxxr =0 Vx' € EQ,T) (2.25)

is satisfied.

The following corollary is a result of Theorem 2.1.36 and will play a significant
role in later applications.

Corollary 2.1.37. Let X be a Banach space and let T € L(X) be a compact
operator. Then we have the following equivalence:

I + T is injective <= I + T is an isomorphism.

2.1.5 Bilinear and Sesquilinear Forms

Let Hy, H, be Hilbert spaces with norms || - || 7, , || - || &, over K. A mapping a(-, ) :
H, x H, — K is called a sesquilinear form if



2.1 Elementary Functional Analysis 33

VYuy,up € Hy,vi,v2 € Hy, A € K : a(uy + Auz,vi) = a(uy,vi) + Aa(uz,vy),

a(uy,vi 4+ Ava) = a(ui,vi) + Aa(up,va).
(2.26)
For a sesquilinear form a : H x H — C the adjoint sesquilinear form a* : H X

H — C is defined by
a* (u,v) =a v, u) Yu,v e H. (2.27)

It is called Hermitian if a = a*.
If K = R we speak of a bilinear form. The bilinear forma : H x H — R is
called symmetric if
a,v)=a,u) Yu,v e H.

A sesquilinear form a (+,-) : Hy x H, — K is continuous (or bounded) if there
exists a constant C < oo with

la(u. )| < Cllull, 1Vl (2.28)

forallu € Hy,v € H,. The smallest C in (2.28) is the norm of a(-, -) and we write

o |a(u,v)|
lall := sup ~ sup

_ (2.29)
we Hy\{0} veHo\{0} [l By V]| Fy

We can identify sesquilinear forms with linear operators.
Lemma 2.1.38. Let Hy, H» be Hilbert spaces over K:

(a) For every sesquilinear form a(-,-): Hy x Hy — C there exists a unique A €
L(Hy, H}) such' that

a(u,v) = (Au, V)Hétz Yue Hy,v € H,. (2.30)

It satisfies
Al s p, < llall- (2.31)
(b) Let S1,S> be dense in Hy, Hy and let the sesquilinear form a(-,-) be defined
on S1 X Sy. We assume that (2.28) holds for all uy € S1, vi € Sa. Then a(-,-)

can be uniquely and continuously extended on Hy x H» and (2.28) holds on
H; x H, with the same constant C = |a||.

' More precisely, A € L (H 1, Hz*), where the anti-dual space H,* contains all bounded conjugate

linear forms on H,. A linear operator is defined by (;fu, V)Hz,tz =a(u,v)forallu € H,,v € H,.

[Recall that complex conjugation in Hilbert spaces is well defined; see (2.15).] Note that A = C”’ Z
where C’ is the dual operator for the complex conjugation operator C as in (2.15). If no confusion
is possible, we do not distinguish in the notation the dual space from the anti-dual space and always
write Hj.
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Proof. (a) For u € Hy, ¢,(v) := a(u,v) defines a linear functional ¢,(-) € H,
with ||(p,,||Hé < C|lu|lg,.- We set Au := ¢, for all u € H;. We then have
||Au||Hé < C||u|| i, and as a consequence (2.31). It also follows that

(A”»V)Hétz = (‘/)u»V)Hétz = @u(v) = a(u,v).

Conversely, let A € L(Hy, H;). Then a(u,v) := (Au, V)Hétz is a sesquilin-
ear form with

[(Aw.v) myxm, | < [ Aull gy Iy < 1Ay my ol oy V] 2, -

(b) According to Proposition 2.1.6, for the above argument we only need to con-
sider the definition of A on dense subspaces S; C Hj, S C H» to extend the
form a(u,v) to Hy x H,. (Au, V)Hétz then denotes the extension. O

The operator A from Lemma 2.1.38 is called the associated operator of a (-, -).

Remark 2.1.39. The results from Lemma 2.1.38 can be analogously transferred to
bilinear forms a : Hy x Hy — R.

Let H be a Hilbert space and let A € L (H,H’). Then A € L(H, H') is
defined by

(Zu, V)H/XH = (Aﬁ, \_}) H/xH>
where complex conjugation in Hilbert spaces is introduced in (2.15). An operator

A € L (H, H') is said to be Hermitian if A = A’. In the case that K = R we use
the term “symmetric”.

Remark 2.1.40. Let H be a Hilbert space and a : H x H — C a sesquilinear
form with associated operator A. The statements (i) and (ii) are equivalent:

(i) a(-,-) is Hermitian.
(ii) A is Hermitian, where

(Zu,v)H,xH = (Au, V) gy = a (u,v) Yu,ve H. (2.32)

Proof. By using the definition of A, A’, and the complex conjugation in Hilbert
spaces we obtain

I~

a* w,v) =a@,u) = (ZV E)H,XH = (Z’ﬁ V)H,XH = <A’u,§

On the other hand, we have

a(u,v) = (Zu,V)H,XH .
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Hence the equivalence is proved:

O

Exercise 2.1.41. If A is associated with the form a(-,-) then C'A’C is associ-
ated with the form a*, where C /~is the dual operator for the complex conjugation
in Hilbert spaces. Similarly, if A is associated with a (-,-) as in (2.32), then A’
corresponds to a*.

A sesquilinear or bilinear form b (-, -) : H; x H, — C is compact if the associated
operator T € L(Hy, Hj) with (Tu, V)Hétz := b(u, v) is compact.

Example 2.1.42. Let Hi = H, = R" with inner product (X,y) = > i_ Xi¥i.
Then every matrix A € R™" induces a bilinear form according to the relation
a(x,y) = (Ax,y) : R” x R" — R. The form is symmetric if and only if A is
symmetric, i.e., if Ajj = Aj;, 1 <i,j <n.

Example 2.1.43. We call a matrix A € R™*" positive definite if it is symmetric and
if we have
(Ax,x) > 0 vx € R™\ {0}.

For positive definite matrices, a (X,y) := (AX,y) defines an inner product on R".

2.1.6 Existence Theorems

Differential and integral equations can often be formulated as variational problems.
In this section we will define abstract variational problems and prove the existence
and uniqueness of solutions under suitable conditions. As standard references and
additional material we refer, e.g., to [9, Chap. 5], [151, 166, 174].

For this let Hy, H» be Hilbert spaces, let a(-,-): H; x H, — K be a continuous
sesquilinear form and £ : H, — K a continuous, linear functional. We consider the
abstract problem: Find u € H; with

a(u,v) =L(v) Vve H,. (2.33)

The form a(-, -) satisfies the inf-sup condition if

. la (u,v)|

in —_— >y >0, (2.34a)
ueHi\{0} ve o\ (0} llull a1y [IVII A,
Vve H\{0}: sup Ja(u,v)|>0. (2.34b)

ue H{\{0}



36 2 Elliptic Differential Equations

Theorem 2.1.44. The following statements are equivalent:

(a) For every £ € (H3) the abstract problem (2.33) has a unique solution u € H,
and we have

1
leellar, = M €11 - (2.35)

(b) The sesquilinear form a (-, -) satisfies the inf-sup condition (2.34).

Proof. (b) = (a):
For the proof we will proceed in several steps:

(i) We choose an arbitrary u € Hj. Then the functional ¢, € H;, which is
given by ¢, := a(u,-), is continuous and linear on H;. This follows from
the continuity of a(-,-) : H; x H, — K since

¢ W)| = la(u,v)| < llall ulla, IVIa, = Cla,w) |[vilm,.

Let A be the associated operator of a (-, -). The mapping u — ¢, can therefore
be written as ¢, = Au. The operator A : H; — H} is continuous and linear,

since
[#u (V)]

ve H>\{0} ”V“Hz

lAull gy = < llall flullz, < oo.

(ii) We will show that the image of H; under A is closed in H;. We have for all
ue Hp

[ (V)] la(u,v)| 2.34a)
= >y llulla,.

lAull gy = sup = su
vemo\(0} IVIlE,  vemo\goy IVIIE

Now, let (u,), C H; be such that (Auy,),, is a Cauchy sequence in H,. Then
(un), is a Cauchy sequence in Hy, since

| At — A”n”Hé = [|A(un — um) ||H§ >y lun — tim|| my -

Therefore the image of H; under A is closed in H;.
(iil) We claim that A (H;) = H,. If this were not true, we would have

AH) = AH) " £ 1),

and the image of H; under A would be a closed proper subset of H). Then,
according to the Hahn—Banach theorem (see, e.g., [141], [3, Theorem 4.1]),
there exists a vo € HY\ {0} with vo (r) = Oforallr € A (Hy).
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As H, is reflexive, it follows that vo € H, =~ HJ and therefore with r =
Au, we have the equation

0=vo(r) =r (vo) = (Au) (vo) = a(u,vg) VYu € H;.

This is a contradiction to (2.34b). Therefore we have A (H;) = H) and then
A : Hy — Hj is surjective. This means that (2.33) has a unique solution for
all{ € Hj.

(iv) We will show the a priori estimate. For every £ € H) the equation Au = { has
a unique solution g = A~'¢ and we have

la(uo, V)| = [€M)| = [€llgs IVl Vv € Ha.

It follows that
la(uo, )| |la(uo, v)|
1l = sup ———— = lluolla, sup —F———
ve Hy\{0} IVl &, ve H>\{0} llwoll £y [1v]| 2>
] a(u,v
> |luollg, inf up —| . v)|
ue i\{0} e 1o\ (o 1l by VI o,
>y lluol &, -
(a) = (b):

If A=' € L(H}, Hy) exists, A € L(Hy, H}) is bijective and the associated
form a(u,v) = (Au, V)Hétz satisfies (2.34b). Now, we will show (2.34a): Since
A € L(H, H) is bijective, with (2.35) we have

(Au,v) iy xm, , (W.v) 1y xm,

inf sup = inf sup
weHNOY e oy Nullan, Ve, weHNO) vermavoy 1AW, V],

w, V) g/
> inf sup . V) 1}ty =: %
we MO vemo\ o} ¥ W e [1VI

According to Conclusion 2.1.18 (a) there exists an isometry Jg, : H» — Hj. We
therefore have

(JHW. V) 1y

* =7y inf sup
e Ha\{o) vemo\(o} Ve Wlag vl A,
. 1 (JH2W’ V)HéXHz
=y_ inf —— sup ——m———F"F—
we Hy\{0} ||W| i, ve H>\{0} VIl &,

1
= inf T JH \;14) =Y.
Y seHn\o0} W]l &, I/a g =y
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Remark 2.1.45. The adjoint conditions

|a (u, v)|

inf B Lk hcA S VA (2.36a)
veHo\0} e g\ oy Ilull &y (V] A,
Yue Hi\{0}: sup |a(u,v)|>0 (2.36b)
ve H>\{0}

are equivalent to (2.34).
Proof. (see [115, Lemma 6.5.3]).

1. (2.34) = (2.306).
From Condition (2.34a) we clearly have (2.36b). In the following we will
show (2.36a). Let A : H; — H} be the associated operator of a (-, -). From
Theorem 2.1.44 we have

[ PP V52 237)

Proposition 2.1.14 gives us H (A’ )_1 HH o < 1/y. We denote the left-hand
<
side of (2.36a) by /. We then have 1

‘(AM’V>H5XH2 ‘(u’ AIV)HI XHI/

I = inf sup ————— =
ve oMb ye\qoy [ullay VI, veE2 MO} uem oy Nulla, [IVIIA,
_ [y
= inf (A) VIR sup
v EH[\{0} wer oy llullm,
= inf AV IV
VIGH{\{O} ” ( ) ||H2 “ “Hl
-1
= ! = H A/ -1 H , > Y.
supverpyo | ()] /I o
This is the same as (2.36a) with y’ = y > 0.
2. (2.36) = (2.34).
The proof of the converse is analogous to the first part. a

Remark 2.1.46. (i) Let A € L(H, H}) be the operator that is associated with the
form a(-,-) (see Lemma 2.1.38). Let (2.34) hold. Then A=\ € L(H), Hy) exists
and

1A ey ey < v (2.38)

(ii) Conversely, if A=Y € L(H), Hy) exists and (2.38) holds, then we have (2.34).
Proof. Part (i) follows from (2.37) and Part (ii) from Theorem 2.1.44. O
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Remark 2.1.47. The following statement is equivalent to the inf-sup condition
(2.34a): There exists a constant y > 0 with

|a(u,v)|

Yu € H{\ {0} :
ve H>\{0} ”V“Hz

> yllull &, - (2.39)

Since a(u,v) = (Au, V)Héle (see Lemma 2.1.38), (2.39) is also equivalent to

Vu e Hi\{0} : [|[Aull gy = yllulla, - (2.40)
Remark 2.1.48. In order to prove the inf-sup condition (2.34a) we will use the
following method: Let u € Hy be arbitrary and given. If we can find a v, € H, with
the following properties:

Wallzr, < Culluly . latu,vi)l = Callully, . (241)

where Cy, C, are independent of u and v, then we have (2.34a) with y = C,/Cj.
Proof. Letu € Hy and v, € H, such that (2.41) holds. Then

. la (u,v)] . la (u,vy,)]
inf > S AN
ue H\{0} ye o\ (o3 Ul Ey VIl — weE (O} [[ull a1y [[vull 2y
Callull3 C
> inf —— H1L 22
ueH O} lullg, Cillulle, Ci

Remark 2.1.49. Theorem 2.1.44 also holds for reflexive Banach spaces Hy, H».

Now let
Hi=H,=H

and let @ : H x H — C be a sesquilinear form. In this case, the associated
variational problem reads: For a given £ € H' find u € H with

a(u,v) = L) Vv e H. (2.42)

The sesquilinear form a(-, -) is called H -elliptic if there exists a constant y > 0 and
a o € C with |o| = 1 such that

Yue H: Re(oa(u,u)) > y|ul%. (2.43)

Remark 2.1.50. I. Leta : HxH — K be a continuous and H -elliptic sesquilinear
form. Then o in (2.43) can be chosen in such a way that we have Re o # 0.

2. Let H be a real Hilbert space and a (-, ) a (real) bilinear form. Then, in (2.43),
we can choose o € {—1, 1}.
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3. The H -ellipticity implies

Yue H: |a(u,u)

v

llullZ- (2.44)
Proof. of 1: If, for o, we have in (2.43) Reo # 0, nothing needs to be shown.
Therefore in the following we assume that Reo = 0 and choose 6 € C\ {o} with
|6] = 1, so that we have
C.lo—o|<y/2 and o # —G
with the continuity constant C, of a (-, -). It then follows that
Re (6a (u,u)) = Re (ca (u,u)) +Re ((0 — ) a (u,u)).
The continuity of a (-, -) gives us
Re((0 —&)a(uw) < Celo =& Julfy < v/2lully .
from which we have the assertion with y < y/2:
Re (5a (uuw) = y ull3y — Celo =& Jull%y = y/2 ul’y -
of 2: Let o be as in (2.43). The assumptions give us that

Yue H :y |ull} < Re(oa(u,u)) = (Reo)a (u,u). (2.45)

From this we have Re 0 # 0. For Re o > 0, (2.45) gives us the estimate a (u, u) > 0
for all u € H. It follows that (Re o) a (u,u) < a (u,u) and 0 = 1 satisfies (2.43).
The case Reo < 0 can be proven analogously with 0 = —1.

of 3: We have y ||u||%{ <Re(oa (u,u)) <l|oa (u,u)| = |a (u,u)|. O

Lemma 2.1.51 (Lax-Milgram). Ler H be a Hilbert space. Let the sesquilinear

forma : Hx H — C be H-elliptic. Then (2.34) holds and the variational problem
(2.42) has a unique solution u € H forall { € H' with

1
lJullg < ;H@”H“ (2.46)

Proof. We will show (2.34a) as in Remark 2.1.48: foru € H we choosev, =u € H.
Then, due to ||v,||g = |lul| 7 and (2.44), we have the inequality

la(u,vi)| = la(u,u)| > y|ul?.

From this we have (2.34a). We can prove the inequality (2.34b) in a similar way.
Thus, let 0 # v € H. Then
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sup la(u.v)| = la(v,v)| = ylvlg > 0.
ue

The statement follows from Theorem 2.1.44. O

Remark 2.1.52. The Lax—Milgram lemma still holds if we replace Condition (2.43)
by Condition (2.44) (see [137, Theorem 5.2.3]).

Note that in (2.43) we do not impose any conditions on the symmetry of a(, -).
If a(-,-) is symmetric the solution of (2.42) can be characterized as a minimum.

Proposition 2.1.53. Let the forma : Hx H — K be symmetric and H -elliptic with
0 = 1in(2.43) [see Remark 2.1.50(2)]. Then for all £ € H’ the unique solution
of problem (2.42) is also a solution of the problem of finding a minimizer of the

quadratic functional
M) = La@,v) — ). (2.47)

If, on the other hand, u € V minimizes Il (-) then u solves (2.42).

Proof. Let u be the solution of (2.42) and v € H\ {0}. Then

2MM(u+v) = a@w+v,u+v) — 2L+ v)

a(u,u) + 2a(u,v) + a(v,v) —2L(u) — 2£(v)

2 (u) + a(v,v) + 2(a(u,v) — £(v))

210 (u) + a(v,v) = 210(u) + y V][5 = 2T (w),

and therefore u solves Problem (2.47).
Now, let u be the solution of (2.47). Then

VveV: 0= L (Mu+ev))|e=o

4 (Lau+eviu+ev) —Lu+ sv))L:
= L (La(u,u)+ ea(u,v) + Le2a(v,v) — L) - sﬁ(v))L:O
=a(u,v) — L)
and thus u solves (2.42). O

In some of the applications that we are going to study later on, we will often
encounter sesquilinear forms a(-,-) that do not satisfy (2.43) but only a weaker
condition, the H -coercivity.

Definition 2.1.54. Let the Hilbert spaces U, H constitute a Gelfand triple H C
U C H’ with the continuous and dense embedding H C U. The sesquilinear form
a(-,-): Hx H — C is said to be H-coercive if there exist constants y > 0, Cy € R
and o € C with |o| = 1 such that
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2 2
Vu e H :Re(oa ) > y ul% — Cu lull? . (2.48)

Remark 2.1.55. The elliptic and coercive forms that we are going to study in this
book will always satisfy the inequalities (2.43) or (2.48) with 0 = 1. However, in
other applications, for example from the area of electromagnetism, there are forms
that have an imaginary principal part and therefore do not allow setting 0 = 1 (see
[40,44]).

Remark 2.1.50(1), (3) can be applied to H -coercive sesquilinear forms appropri-
ately.

Remark 2.1.56. 1. Let a : H x H — K be a continuous and H -coercive
sesquilinear form. Then o in (2.48) can be chosen so that Rea > 0.

2. The H -coercivity implies that
Vue H: Ja@.u)| = yluly - Cullulf . (2.49)

H -coercive forms a(-,-) remain H -coercive when perturbed by the addition of
suitable forms b(-,-) which are either “small”with respect to the form a(-,-) or
compact.

Lemma 2.1.57. Let the Hilbert spaces U, H constitute a Gelfand triple H C U C
H'’ with a dense and continuous embedding H C U. Let the sesquilinear form
a(-,"): Hx H — C be H-coercive and letb : H x H — C be continuous. Then
the form a(-,-) + b(-,-) is again H-coercive if one of the following conditions is
satisfied:

(i) For all ¢ > 0 there exists a constant C(g) > 0 with
Vue H: |buw)] < elull + C(e) ull?. (2.50)

(ii) X, Y are Hilbert spaces with continuous embeddings H C X CU, H CY C
U. One of the embeddings H C X, H C Y is compact. Furthermore,

Yu,ve H: |b(u,v)| < Cp|lullx Ivlly- (2.51)

(iii) The embeddings H C X C U,H C Y C U are continuous and (2.51) holds,
as well as:

For all € > 0 there exists a constant C (g) > 0 such that for allu € H (252)

lully = elulg +C@) lluly or ulx < elullg +Ce) llully -

Proof. We will show (a): (i) implies the coercivity of a (-,-) + b (-, -), (b): (i1) = (iii)
and (¢): (iil) =(>):
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(a) In (2.50) we set ¢ = y/2 with y from (2.48). Then for all u € H
Re (o{a(u,u) + b(u,u)}) = Re (ca(u,u)) + Re (ob(u, u))

>y lullyy — Cu lluly — % lulfy — Ce)llulz
2 lully — (Cu + C() llull,

which is (2.48) fora(-,-) + b(-, ).
(b) As an example, we consider the case H CC X C U. Lemma 2.1.35 implies

Ve>03C(e) >0: VYue H:|ulx <elulg +C()|ulu,  (2.53)

from which we have (2.52).
(c) The embedding H C Y is continuous and therefore there exists a constant
Cy < oo with
Vue H: |luly <Cy |ulla.

As an example, we assume that the right-hand inequality in (2.52) is satisfied.
Then, by (2.51), we have for all ¢ > 0 the inequality

Yue H: |bu,u)| < Cpllullx ||ully

CoCr (e lull3; + €@ lullw lull )
C 2

CoCy (2elluly + S2° July )

A IA

e lulyy + C'(e) luly

and thus we have (2.50). O

Remark 2.1.58. Lemma 2.1.57 still holds if Condition (2.48) is replaced by the
Gdrding inequality: There exists a compact operator T : H — H' such that

Vue H :la(uu)+ (Tu,u)gg| >y llullF -

For a proof of this remark, we refer to [137, Remark 5.3.2]. The following special
case of Lemma 2.1.57 is particularly important when dealing with boundary integral
equations.

Corollary 2.1.59. We assume that U, H, H' form a Gelfand triple H C U C H'
with a compact embedding H CC U. Let a(-,-) be H-coercive and let either b(-,-):
HxU — Corb(,):UxH — C be continuous. Then a(-,-) + b(-,-) is
H -coercive.

The following theorem is an application of the Fredholm—Riesz—Schauder theory
to H -coercive sesquilinear formsa : H x H — C.
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Theorem 2.1.60. Let H C U C H' be a Gelfand triple with a compact and dense
embedding H CC U. Let the sesquilinear form a(-,-) : H x H — C that is
associated with the operator A € L(H, H') be H -coercive.

Let I denote the embedding: I : H — H’. Then we have for all . € C either

(A—A)"'eL(H'.H) and (A —AI)"' e L(H',H) (2.54)

or
A is an eigenvalue of A. (2.55)

Should (2.54) hold, then the variational problems: Find x, x* € H such that

a(x,y) = Ax,y)v = (£, ¥ < and a(y,x*) —A(x*, y)y
= (f.Y)H'xH Vye H (2.56)

have a unique solution for all f € H'. Should, however, (2.55) hold, then the
eigenspaces

{0} # E(X) = ker(A — AI), {0} # E’'(A) = ker(4' — AI)
are finite-dimensional and we have for all y € H
xeER): alx,y)=A(x,y)v, (2.57)
x* e E'MV): a(y,x*) = A(x*, ). (2.58)

The spectrum o (A) of A consists of at most countably many eigenvalues {A;} and
the only possible accumulation point is at infinity. Furthermore, we have

A eo(Ad) < Lea(A).
For A € (A) the variational problem

x€H:alx,y)—A(x,y)u =(fy)uwxu VyeH (2.59)

has at least one solution ifand only if f 1. E'(L), i.e., ifand onlyif f € H’ satisfies
the compatibility condition

Vx*e E'A) . (fix®gxm = 0. (2.60)

Proof. The statements follow from Theorem 2.1.36. Here we check the assumptions.

If H CcC U then we also have H CC H’ and the embedding I : H - H'
is compact. Due to Remark 2.1.56(1) we can assume that Reo # 0 and set C :=
Cy/Reo.
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The sesquilinear form a (-, -) + c II ||%] is H -elliptic since, by (2.48), we have for
allue H

Re (ota(u,w) + C ully}) = Re (0a (w.w) + Cu lully = v Jully

with y > 0. According to Lemma 2.1.51, (4 + 6'/1)_1 € L(H', H) exists.
Lemma 2.1.29 states that K := (A + C1 Y1 H - His compact, and therefore
Theorem 2.1.36 can be applied to the operator K — ul. With
~ ~ 1
K—pl =—pu(l—pu'K)y=—pu(A+CIHy Y (A+CI—-—1)
uw
=—u(A+CI) Y (A—AD)

and A = u~! — C we obtain Theorem 2.1.60 for
1 ~
A=A = —— (A+CI)(K — pul)
m

as a consequence of the statements of Theorem 2.1.36 for K — 1.
O

The combination of Corollary 2.1.59 and Theorem 2.1.60 gives us the following
existence theorem, which is often used in the variational formulation of integral
equations.

Corollary 2.1.61. We assume that U, H, H' form a Gelfand triple H C U C H'
with compact embedding H CC U. Let a(-,-) and b(-,-): H x H — C be
continuous sesquilinear forms, let a(-,-) be H-coercive and assume that b(,-)
satisfies
Vu,ve H: |b(u,v)| = Cp llully vila or [bu,v)| < Cpllulla lIvlu-

Furthermore, let the form c(-,-) := a(-,-) + b(-,-) be injective:

Vwve H: c(u,v) =0= u=0. (2.61)
Then for every | € H' the variational problem

ue H: aw,v)+bdbu,v)=(f,vimxg VYveH (2.62)

has a unique solution u.

Proof. According to Corollary 2.1.59, c(:,-) is H-coercive and satisfies (2.48).
According to (2.61), A = 0 is not an eigenvalue of a(-,-) + b(-,-) and so Problem
(2.62) has a unique solution, as stated by Theorem 2.1.60. O
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2.1.7 Interpolation Spaces*

When dealing with the variational formulation of boundary integral equations as
well as the error analysis of boundary element methods, it is very useful to study
function spaces that describe the differentiability of a function. In classical analysis
differentiation is only defined for integer orders. However, by using “interpolation
spaces” it is possible to formulate properties concerning the smoothness of func-
tions for non-integer orders of differentiability. There are different, not necessarily
equivalent interpolation methods. Here we will only introduce the “real interpola-
tion method”. For a detailed discussion on interpolation spaces as well as proofs we
refer to [22] and [155].

Let Xy, X1 be two Banach spaces with continuous embedding X; < Xy (this
property is not strictly necessary; however, in the cases that are of interest to us it is
always given). For u € X and all # > 0 we define the “K-functional” as

K(t,u) ;== inf (lu—v|x, +t|Ivllx,)- (2.63)
veX|
Clearly, we have for u € X,
K(t,u) <tlullx,, K u) =< |lullx,-

For0 <6 <1land 1 < p < oo we define the norm

0 1/p
—fp » 4
lullixo.x110., = t K(t,u) - . (2.64a)
0
For p = oo we define
[l ixo X110 i= Sup t% K(t,u). (2.64b)
0<t<oo

Then the set

[X07X1]9,p = XG,p = {I/l € XO : ||u||[X0,X1]g’p < OO}
is a Banach space with norm (2.64).
Let X;,Y;,i = 0, 1, be two pairs of Banach spaces as given above, with X; C ¥;.
We then have

Xg,p CYop, X1 CXy,p CXo, Xg,p C Xp,00

* This section should be read as a complement to the core material of this book.
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and Xg; C Xg,p forall 1 < p < oo. The spaces Xy, , form a scale:
Xo,,p C Xo,,p forl =< p=<o0,0; <0..

Proposition 2.1.62. Let X;, Y; be two pairs of Banach spaces and let TeL(Y;, X;),
i = 0,1. Then we have

T eL(Yyp Xgp) for0<6=<1 1<p=<oo (2.65)

and
1T I xp o, < 1T v IT 1%, <v,- (2.66)

Another important result is the “re-iteration theorem”. It states that one cannot
obtain “new” interpolation spaces by repeated interpolation.

Proposition 2.1.63. We have for all 0 < 6y < 6 < 1, 1 < po, p1,q9 < o0 and
0<A<l:

[[X07X1]90,p0’ [XO’Xl]el,pl]A,q = [XO’ Xl](l—k)@o-l—/le],q'

The dual spaces of interpolation spaces are isomorphic to the interpolation spaces
of the respective dual spaces. The following proposition will clarify the details.

Proposition 2.1.64. Let X be dense in Xo. Then we have for all 0 < 6 < 1,
l<p<oo 5+ =1

[Xo. X1lp , = [X1. Xoli-6,» = [X¢. X1lo,pr-

For functions from X;, the square of the norm of the interpolation space
[Xo, X1]o,p can be estimated by the product of the norms in Xy and X;. We only
need this result in the case p = 2.

Proposition 2.1.65. There exists a constant ¢ > 0 such that for all u € X, the
inequality
< 1-6 (4
lllixo, x170., = € lullxy” llulx,
is satisfied.

We refer to [230], [22] and [155] for proofs of these statements as well as further
reading.

2.2 Geometric Tools

2.2.1 Function Spaces

Boundary integral equations are formulated on the surfaces of domains in R?. In
order to define the relevant function spaces on the boundaries one has to char-
acterize the smoothness of the boundaries. For this one needs Holder continuous
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parametrizations that have to be introduced first. Let k € Ng and let 2 € R? be
a domain. The space of all k times continuously differentiable functions on 2 is
denoted by

Ck(Q):={f:Q — C: fisk times continuously differentiable
and 0% f can be extended as a continuous function on Q
forall 0 < || < k}.

Herea € Ng is a multi-index and we use the following conventions. For p € N(‘)i
we set

d d
| - — A — — . = ;
uhi= [t lil= Duli= Qs il 2= max il

i=1 i=1

d
Vv = (v,-)l-d=1 € Chyh = Hvﬁ“, M f(x) =0k f (x):=

i=1

ol f(x)
T gk
(2.67)
On the vector space C¥ (m we can define the following norms

o R o
lellicocg) = sup e lellerg) = olax {||8 ‘/’||c0(@} :
A function ¢ € C° () is Holder continuous of order A € ]0, 1] in €, if

0] — w |</>(X)—</>(y)|<oo
pler@ = e Ix—yl

The set of all Hélder continuous functions is given by C % (m The space C** (ﬁ)

contains all functions on Q with 3% € C%* () for all || < k. On ckA () a
norm is given by

Iellcra @) = llellck@) + max [0%¢lcoa(q) -

Remark 2.2.1. Forallk € Nyand0 <A <1, CckA (Q) is a Banach space.

Exercise 2.2.2. Let u € [0, 1]. Determine the maximum A € 10, 1] so that the
function f : (—1,1) = R, f (x) = |x|" lies in the space C°* ([—1, 1]).

The space of all infinitely differentiable functions is given by

c=@:= ) ct@.

kENO
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All the functions we have considered so far are scalar, i.e., they map points from
a domain 2 to C. The definitions can, however, be generalized for vector-valued
functions ® = (@i)fizl - Q1 — €5 on domains Q;, 2, C R?. We set

Q1. Q) = {q> Q> Q| VI<i<d:® eCkt (sz_)} (2.68)

If the condition ®; € CckA (Q_l) in (2.68) is replaced by ®; € ck (Q_l) we
obtain the space Ck (Q_,m For Q1 = Q5> we use the notation CckA (27) =

Ck* (Q1, Q) and similarly C* (Q) := C* (21, Q).

Definition 2.2.3. Let Q1, 2, C R? be two domains and let k € Ny U {o0}. A
mapping ® : Q; — QrisaC k -diffeomorphism if it satisfies the conditions (a)—(c):

(a) ® € CF (Q, Q).

(b) The inverse mapping ®~! : Q, — Q exists and satisfies

o' e CF (. ).

(c) There exists aconstant 0 < ¢ < oo such that the Jacobian D® = (g%)
i J1<i,j<d
satisfies the inequality
VxeQ;:0<c <|det(DP (x))] < 1/c. (2.69)

Remark 2.2.4 , follows from the inverse mapping theorem (see, e.g., [245,
Sect. 8.6], [95, Chap. 8]).

Remark 2.24. IfQ C R? is bounded, (a) and (b) imply (c).
Ifk > 1 and @ is surjective, (a) and (c) imply (b).

Definition 2.2.5. A function d>_ : Q1 — Qy s bi-Lips_chitz continuous if in
Definition 2.2.3 we have C®! (Q;, ;) instead of C¥ (©2;,Q;) and

d(x)— P
0<c < sup M <1/c (2.70)
X,yeQ ”X_y”
X£y

instead of (2.69).

The space of all Lebesgue measurable functions that are bounded almost every-
where on €2 is denoted by L*° (€2). The term “almost everywhere” always refers to
everywhere except on sets with Lebesgue measure 0.
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Proposition 2.2.6. Ler @ C R? be bounded and let ¢ € C%! (), d = 2. Then we
have:

(a) Forall ¢ € C%! (m the partial derivatives (8<p/3xi)§i:1 exist almost every-
where in 2, they are measurable and bounded almost everywhere, i.e., 0%¢ €
L% () forall |a| = 1.

(b) We have the more general property for k € Ny

peCh (Q)= "9 el®(Q) V| <k+1l

2.2.2 Smoothness of Domains

In order to describe the smoothness of domains one uses local as well as global cri-
teria. Lipschitz domains represent a reasonably general class of domains for whose
boundaries integral equations can be defined. Lipschitz domains are given by the
existence of an atlas which consists of bi-Lipschitz continuous charts. In Chap. 4 we
examine Galerkin boundary element methods in order to numerically solve integral
equations, for which it is necessary to decompose the surface into curved triangles
and rectangles. To be able to do this the surface needs to locally satisfy a greater
degree of smoothness.

In general, we assume that  C R is a domain with compact boundary T’ =
9. For r > 0, B, denotes the open ball in R? with radius r around the origin.
We set

B :={£€B, :£4 >0}, B :={£€B,:£ <0},
BY:={teB, £ =0}. (2.71)

Definition 2.2.7. A domain @ C R is a Lipschitz domain (Q eC 0’1) if there
exists a finite cover ¢ of open subsets in R? such that the associated bijective
mappings’ { xu :By—>U }U <, have the following properties:

qu € COY (B U), xp' € CO1 (U, By).
xu(BY)=UnNT.

v (Bf)=Unq.

xu (By) = UNRA\Q.

e

Letk € NU {oo}. A domain € is a C*-domain if Property 1 can be replaced by

1o e CH(BD). 17 e CH(U.F).

Remark 2.2.8. Properties 2—4 in Definition 2.2.7 express the fact that 2 is locally
situated on one side of the boundary 0S2.

2 The choice of the radius r = 2 for the ball K, is arbitrary but will slightly reduce the technicalities
in the definition of boundary element meshes because the master element then is contained in K.



2.2 Geometric Tools 51

In order to describe the local smoothness of the surface we use surface meshes.
For this, letg € N,

Sy={teRI:0<t <b<..f1<E<1)

be the unit simplex and R
Qg :=(0,1)?

be the unit cube. In the following these domains will be called reference ele-
ments and will be abbreviated by 7,. If there is no confusion with respect to the
dimension ¢ we will simply write 7.

Definition 2.2.9. Let Q C RY (for d = 2,3) be a bounded domain with bound-
ary I':

1. A subset T C I is called a boundary element or panel of smoothness k € Ny U
{oo} — in short a C¥-element — if there exists a C¥-diffeomorphism y; : 7 — ©
which can be extended to a C¥-diffeomorphism y* : t* — t*. Here t* c R?~!
signifies a neighborhood of TandT C 7*.

2. A set G is called a surface mesh (of smoothness k € Ny) if:

(a) All T € G panels are of smoothness k.
(b) The elements of G are open and disjoint.

© I'=U,;eqT

3. A surface mesh G does not have any hanging nodes if the intersection T N 7 of
all non-identical elements 7, ¢ € G is either the empty set, a common point or —
if d =3 —acommon edge.

Definition 2.2.10. A bounded domain Q C Rd, d = 2,3, is piecewise smooth
with the index k € NU {oo}, in short Q € CK | if:

pw’

1. There exists a surface mesh G of smoothness k.
2. Q is a Lipschitz domain, where the mapping yy from Definition 2.2.7 can be
chosen in such a way that yy|, = xr.

Similarly, the boundary I' = 92 of a bounded C;‘W-domain QcRY d =203,
is also called piecewise smooth with the index k € NU {oco} and is denoted by
I' e Cg‘w.

The definition of C;‘W-domains that we have presented here has been chosen in
such a way that we will not need to introduce a new notation for the discretization.

Exercise 2.2.11. Show that polygonal domains (domains whose boundaries are
described by polygonal curves) are Lipschitz domains.

Show that the bounded (cusp-) domain Q C R? which is bounded by the bound-
ary segments {0} x [0, 1], [0, 1/2] x {1}, {(¢,¢°) : 0 <t < 1/2}, {1/2} x [275, 1] is
not a Lipschitz domain for all s € (0, 1) (see Fig. 2.1).

A surface mesh allows us to define piecewise smooth functions on surfaces.
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Fig. 2.1 Cusp domain as in
Exercise 2.2.11

Definition 2.2.12. Letk € NoU{oo}andI" € lew. A function f : ' — C iscalled
k times piecewise differentiable if there exists a surface mesh G of smoothness k
with

foX,eCkG) Vieg.

The set of all k times piecewise differentiable mappings on I' is denoted by C;‘W (I').

2.2.3 Normal Vector

Let @ C R? with d = 2,3 be a bounded domain of the type CplW and let G be

the surface mesh from Definition 2.2.9 of smoothness k > 1. The sphere in R? is
denoted by Sy_;. For x € t € G we define a normal vector n (x) € Sy_1 by

(0, ®)" d=2
n(x) :=
(Oxz (§) /081) x (0= (§) /052) d =3
with § = )(r_l (x) andvt = ( "2 )
—
n(x):=n(x)/[nx]. (2.72)

In general, we assume that the orientation of the charts y, is chosen in such a way
that the normal vector points towards the unbounded space outside of €2:

Remark 2.2.13. . For domains of type CplW the set

%xeF:xgé Ur§

T€g

has zero surface measure. Therefore (2.72) defines an outer normal field on T’
almost everywhere.
2. For domains of type C there exists a normal vector for allx € T.

Lemma 2.2.14. Let t be a C?-element. Then there exists a constant 0 < Cp < 00
such that
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I(n(y).y —x)| < Cally —x|*.

Proof. Let x; : T — 1 be the C2-diffeomorphism given in Definition 2.2.9. For two
points X,y € T we set

=7 and §i= ' ().

The mean value theorem guarantees the existence of a point £ on the line [X, §] such
that

n@y).y—x) =0, x ¥ — 1 ®) = (n(y). T () F-%),

where J; := Dy, € R¥*(@=1 g the Jacobian. Since n (y) is perpendicular to the
column vectors of J; (¥), we have

n@y).y—x)=0y).J: ¢ -J: ) F-%).

The assumptions we made concerning the smoothness of 7 imply that the matrix J,
is continuously differentiable (componentwise). This, however, proves the assertion
since

3 2
). T E-FEF - <ClE=F1> ) Im WIF—%;

i=1j=I
<G| ® -2 @] <G ly—xI*.

O

2.2.4 Boundary Integrals

Let 7 be a C!-panel with the parametrization y, : 7 — r andlet f : 7 — C be a
measurable function. Then the surface integral of f over T can be written as

/ f(X)dsx = [ F®) Vg®)dx  with f:= foy.. (2.73)

Here g signifies the Gram determinant, which is defined as follows. The Jacobian

of the parametrization y. is denoted by J; := Dy, = (g%) 1<i<d - The Gram
7 1<j<d-1
matrix is given by

G R :=JT %) J; (%) € RE-Dx@-D)
The surface element \/m in (2.73) is the square root of the determinant of the

Gram matrix
g (X) :=detG (X).
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More generally, for piecewise smooth boundaries I" € CplW and measurable func-
tions f : ' — C we have

[ @asi=3 [ F 6 Ve @

reg /'’

where fr = f o y; and /g7 is the surface element of the parametrization y.
For a measurable subset y of a surface I' we denote the surface measure by
ly| == /. v 1dsy. For measurable subsets @ C R we use the same notation and set

lw| == [, 1dx.

2.3 Sobolev Spaces on Domains €2

Results concerning existence and uniqueness can be formulated for elliptic bound-
ary value problems by using Sobolev spaces on domains. We will briefly review
some of the properties of the function space L? (), after which we will introduce
Sobolev spaces. The relevant proofs can be found in [242], for example.

We consider an open subset  C R?. L2 (2) denotes all Lebesgue measurable
functions f : Q — C that satisfy [, | f |* dx < co. We do not distinguish between
two functions u, v if they differ on a set of zero measure.

Theorem 2.3.1. L2 (Q) is a Hilbert space with inner product
(u,v)o,0 = (U, v)12¢q) = /Q u (x)v(x)dx

. ) 1/2
and norm ||ullg q = llull 2y = (U, u) g

If there is no cause for confusion we will simply write («, v), and ||u|, instead
of (1, V)o.g and [Jul g

It is not possible to define classical derivatives (e.g., pointwise as the limit of
difference quotients) for functions from L? (). In order to define a generalized
derivative we use the fact that every function from L? () can be approximated by
smooth functions. For a continuous function u € C° (Q),

supp (1) := {x € Q :u(x) # 0} (2.74)

denotes the support of the function u. The space of all infinitely differentiable
functions on 2 is denoted by C *° (£2) and we set

CS(Q) := {ue C®(Q) : supp () CC Q.
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The space of all functions from C*° (2) with compact support is defined as
._ d - . d
Coop (@) := C§° (R )‘Q = {ulg rue cge (RY)} 2.75)

Remark 2.3.2. It should be noted that the support of a function u € C2° () is

comp
compact in R but in general is not compact in Q2. Therefore we have Ceomp (2) #

Cy° () for domains @ # Q # R4,
Lemma 2.3.3. The spaces C*® (2) N L? () and C{° (Q) are dense in L* ().
Definition 2.3.4. A function u € L? (Q2) has a weak derivative g := 0% € L? (Q)
if the property
(8o = D @ vwo.  YveCF Q)
is satisfied.
We denote the weak derivative by 9d,,,.

Remark 2.3.5. [fu has a weak derivative 3%u € L? () and the classical deriva-
tive 0%u exists on w C K then these two derivatives coincide on w (almost
everywhere). For this reason, in the following we will omit the index w in 9%,

Definition 2.3.6. Let  C RY be a bounded domain. For { = 0,1,2,... the
Sobolev space H* (Q2) is given by

HY (Q) = {p € L>(Q) : 8% € L>(Q) forall |a| < €}. (2.76)

On the space H* () we define the inner product

(@)=Y @9 8Y)= ) /Qa‘%pmdx (2.77)

loe|<£ le]<t

and the norm
1/2
lolle == (@.0),/>. (2.78)

The space H* () is sometimes denoted by W2 (Q). We will also need the space
Wh®(Q) := {p € L®(Q) : 8% € L*® (Q) forall |a| < £}
which is equipped with the norm

Vo e Wh (Q) lellweooq) = max 0% Loo(g) -

If in (2.77) we only sum over those multi-indices with |a| = £ we can define a
seminorm on H ¢ (Q) by
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2 2
lplf =D [ 0%0[* dx. (2.79)
Q
|or|=£

Sobolev spaces can also be defined for non-integer exponents. For £ € R, [{]
denotes the greatest integer for which [£] < £. For a non-integer £ > 0, i.e., { =
|£] + A with A € (0, 1), we define

(@ V)= Y, (0% 0%), (2.80)
le|< €]
(0% (x) — ¢ () (% ¥ (x) — 3* V¥ (y))
+ dxdy
%« | /szsz Ix —y|| >
and
lelle == (@.0),/. (2.81)

For a non-integer £ the Sobolev space H* (Q) is defined as the closure of
{ue C®(Q): |ull, < oo} (2.82)

with respect to the norm ||-||, from (2.81).

Proposition 2.3.7. The space H® (Q) is a separable Hilbert space, i.e., H® ()
has a countable basis (see Sect. 2.1.1.3). We can define an inner product by (2.77),
(2.80) and a norm by (2.78), (2.81).

The fact that certain smooth function spaces are dense in H* () becomes very
helpful with respect to techniques used in proofs concerning Sobolev spaces.

Definition 2.3.8. Hg (£2) is the closure of the space Cg*° (£2) with respect to the
|-l norm.

Proposition 2.3.9. We have
HO(Q) = HO(Q) = L2(2). H* (Rd) = H! (Rd> .

Proposition 2.3.10. Let @ C R? be open and let £ > 0. Then the space H* () N
C () is dense in H® (Q).

The proofs of Proposition 2.3.9 and 2.3.10 can be found in [242, Theorems 3.3—
3.6, Conclusion 3.1], for example.

The Sobolev spaces H*(Q) of non-integer order £ = [£] 4+ A can also be
characterized by interpolation. We have

Proposition 2.3.11. Let k € Ng and 0 < A < 1. For a bounded domain Q with a
Lipschitz boundary we have

H(Q) = [HF(Q), HF Y (Q)]1.. (2.83)

A proof can be found in, e.g., [230] or [155].
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2.4 Sobolev Spaces on Surfaces I

In order to define boundary integral equations one needs Sobolev spaces on bound-
aries ' := 90Q of domains. These are defined with the help of Sobolev spaces on
Euclidean (parameter-) domains by means of “lifting”.

2.4.1 Definition of Sobolev Spaces on I"

Let @ C R¢ be a bounded Lipschitz domain. We can define coordinates on the
boundary I := dQ2 with the help of a surface mesh G. For this we use the notation
from Definition 2.2.7 and introduce the following restrictions

)(U,()ZBS—>U03=UHF, XU, 0 ‘= XU|B£)'

Now we can define a coordinate system a = (Uo, XZ/lo) as well as a subordi-
Y veu

nate partition of unity {fy : I' = R}y, by

L= puonT,  supp(Bv) Clo, PuorvocCy" (BS) :
Ueu

Functions ¢ : I' — C can be localized with the help of this partition. The function
v = By : T — C satisfies  supp (py) C Up.

If Q is a C¥-domain with k > 1 we can carry out the localization in an analogous
way, in which case the functions yy,o are C k_diffeomorphisms. The smoothness of
a function on the surface I' is characterized by the smoothness of the pullback of
the localized function to the parameter domain. In this light, we define

@:(/)UOXU,():BS—MC, Uel.

Therefore it is obvious that the maximal smoothness of the domain €2 is an upper
bound for the order of differentiability of the Sobolev spaces on I'. More specifi-
cally, for C%' or C¥-domains, only Sobolev spaces H* (I') with a maximal order
of differentiability £, invariant under the choice of the coordinate system, that satisfy

£ <1 for Lipschitz domains €2, 2.84)

¢ < k for C*-domains ’
can be defined. We use the previously introduced notation for the following defini-
tion.
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Definition 2.4.1. Let Q@ C R be a bounded C%! or C*-domain with k > 1. We
assume that (2.84) is satisfied for £ € R>¢. The space H ¢ (I") contains all functions
¢ : T — C that satisfy gy € H{ (BY) forall U € U.

In the same way as in (2.80), we can define a norm on H* (T") for ¢ € H¢(I")
by setting A := £ — |£] and

Z ||§0a||2LZ(r) if £ € Ny,
le] <t
lell7 = 0 — o ,
Yo (X) — Qo (¥ .
Z ”(pa”%}(r) + Z / wdsxdsy if{ € ]R\No,
lol<Le] wl=1e)? T Ix =l
(2.85)
where the functions ¢, : I' — C are given by
o () := Y _ 3% (@0) (€) withx = yu0 (§) (2.86)

Ueu

and 8‘5" denotes the differentiation with respect to the variable &.

Formally, the Sobolev space H* (') depends on the chosen coordinates. Should
it be necessary, we will write H, (f (T) instead of H* (). It can, however, be shown
that H¢ (') is defined invariantly on I" under the condition that there is a suitable
relation between the order of differentiation £ and the smoothness of the boundary.

Proposition 2.4.2. Let Q be a bounded Lipschitz domain or a C*-domain with
k > 1. We assume that the index of differentiation £ satisfies (2.84). Let a1, a be
two coordinate systems on . Then the spaces H (fl (I'Yand H 52 (T') are equivalent,
i.e., they contain the same set of functions, and the norms are equivalent.

The proof of this proposition can be found in [242, Theorem 4.2].
Sobolev spaces H¢(T") of non-integer order can also be characterized by inter-
polation. We have the following theorem, which is analogous to Proposition 2.3.11:

Proposition 2.4.3. Ler Q@ C R? be a bounded Lipschitz or C*-domain with k > 1
and T" := 0Q2: Furthermore, let { € Ny be such that £ + 1 satisfies Condition (2.84).
Then for0 < A < 1

H* () = (HZ (T), H ! (I‘))A - (2.87)

More generally, if L1, £ satisfy (2.84) then

HYT) = (He‘ @), H‘z(r))A . (2.88)

Jorl =21 + (1 = Al with0 <A <1.
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We have introduced Sobolev spaces with non-negative differentiation indices for
domains €2 and their boundaries I". The dual spaces of these Sobolev spaces contain
all the continuous linear functionals defined thereon. Let X be either a domain €2 or
a surface I'. Then the following notation is used for the dual space:

H(X) = (H(f (X))/, ¢>o0. (2.89)

Note that in the case of closed surfaces (X = I') the boundary of X is the empty set
and therefore H(f (X) = H (X).

All the results for H(f (X) concerning density can be directly transferred to the
dual spaces. Due to the Riesz representation theorem (Theorem 2.1.17) for every
F € H™*(X) there exists an element f € H(f (X) with

FO) =0 Npee  YveHi(X).

If a space U is dense in H(f (X), then for every functional F € H ¢ (X) there exists
a sequence of elements (f;);en, in U such that

1—>00

2.4.2 Sobolev Spaces on Ty C T’

In order to formulate integral equations on domains with “cracks” we need Sobolev
spaces on open manifolds with boundary conditions. In the following we will briefly
discuss the most important definitions and properties and refer to [162, Sect. 3], for
example, for a more detailed discussion.

Let Tg C I' be a measurable subset of the boundary with [I'g| > 0. The Sobolev
space H® (I'y), s € [0, 1], is defined by

H® (To) := {ue H*(T') : supp (u) C To}. (2.90)
The norm on H* (Tp) is given by
leel s 0y = " | sy » 2.91)

where u* denotes the extension of « on I" by zero.

Exercise 2.4.4. Let I' = (—1,2) and Ty = (0, 1). Show that the characteristic
function
1 x €Ty,

u(x) = 0 otherwise

isin HS (o) for s < 1/2 but not for s > 1/2.
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The spaces with a negative index are again defined as dual spaces: H™ (Ty) :=
(H* (Tp))’ for s € [0,1]. Conversely, we have: H ™5 (Ty) = (HS (1"0))/ fors €
[0, 1]. Note that for closed surfaces I" the spaces H*(I") and H*(I") are isomorphic.

2.5 Embedding Theorems

The spaces H® (), H (T") are nested for a continuous scale of indices £.

Theorem 2.5.1. There holds

HY(Q) c H2(Q)

In the case of a surface we require that Condition (2.84) is satisfied with £ = £;.

The Sobolev spaces with a positive differentiation index £ together with L2 ()
and their dual spaces form a Gelfand triple.

Proposition 2.5.2. For { > 0 the triples

HY (@) c 12 @) c (H' @)
HE(Q) € L2(Q) C (HE ()
HY () c L2(T) (H‘ (I‘)>/

are Gelfand triples, whereby we again require that Condition (2.84) be satisfied in
the case of a surface. The inner product (-,-)12(q) can therefore be continuously
extended to dual pairings on H® (Q) x (HZ (Q)),, (HZ (Q)), x HY (), H(f () x
(HOZ (Q))/ and (HOZ (Q))/ X HOZ (§2). Analogously, the inner product (-, )2y can
be continuously extended to dual pairings on H® (I') x (HZ (I‘))/ and (HZ (I‘)), X
HY ().

Notation 2.5.3. Assuming the same conditions as in Proposition 2.5.2 we again
denote the extensions by (-,-)r2(q) and (-,*)2(r), in case the relevant function
spaces can be determined from the arguments. If the domain Q2 is clear from the
context, we simply write (-, ).

It is interesting to know under which conditions every function (equivalence
class) ¢ € H®(Q) has a continuous representative. This question is answered by
the Sobolev embedding theorem.

Theorem 2.5.4 (Sobolev Embedding Theorem). Ler @ C R be a bounded Lip-
schitz domain. Then for € > d /2:
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H Q) cC’(Q).

For bounded C*-domains Q, k > £, functions (equivalence classes) ¢ € H®(Q)
have an m times continuously differentiable representative for integerm < £—d /2:

HY Q) cCc™(Q)
with a continuous embedding:
lellem@) = € llellae) - Vo e HY (Q).

In order to determine whether a function from H*2 () can be approximated
with respect to a (weaker) norm ||-|l¢, o, i-e., £1 < {2, the compactness (see

Definition 2.1.31) of the embedding I : H% (Q) — H* (Q) will be crucial.

Theorem 2.5.5 (Rellich). Ler Q@ C R? be a bounded Lipschitz domain. Then
the first of the embeddings in (2.92) for £1 > {5 is compact. To guarantee the
compactness of the second embedding, Condition (2.84) also has to be satisfied.

The proof can be found in, e.g., [3,242].

In some proofs, results are first proven for dense subspaces of Sobolev spaces.
They are then applied to the Sobolev spaces by considering Cauchy sequences and
their limits. Keeping this in mind we will use Rellich’s embedding theorem (see,
e.g., [3, Sect. 5.9(4), A 5.4], [242]).

Theorem 2.5.6. Let Q@ C R? be a bounded domain with a Lipschitz boundary.
Then the embedding H' (Q) — L?(Q) is compact, i.e., there exists for every
bounded sequence in H' () a subsequence that converges with respect to the norm
in L? ().

The Poincaré inequalities are useful consequences of these compact embeddings.

Theorem 2.5.7. Let Q@ C RY be bounded and { = 1,2,... . Then for all ¢ €
Hg (Q)
lel7 o < € (1 + diam@)** > / |0%0|* dx. (2.93)
Q
|a|=2£

The inequality in (2.93) is also referred to as the Friedrichs inequality.

Corollary 2.5.8. Let T'p be a subset of the boundary T" with a positive (d — 1)-
dimensional surface measure. Theorem 2.5.7 remains valid if the space H(f () is
}H'lle.sz

replaced by the space {(p e C® (5) c9g=00nTp

For ¢ € H* (Q), this assertion is only true in the modified form (2.94).
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Theorem 2.5.9. Let 2 C R? be a Lipschitz domain. Then for all ¢ € H* ()

f % pdx
Q

The inequalities (2.93) and (2.94) are called the first and second Poincaré
inequalities and are proven in [166, Theorems 1.1 and 1.5].

2
(2.94)

lolg<c{ > [Q|a“<p|2dx+ 3

|oe|=¢ || <€

Corollary 2.5.10. Ler Q@ C R? be a Lipschitz domain. Then there exists a constant
cq > 0 such that for all o € H' (Q)

inf [lo —Z||1,sz =cq |‘/’|1,Q .
z€R

Proof. Choose a := [ ¢dx/|2| and define ¢, := ¢ — a. It then follows from
(2.94) that

inf o~ 2lha < sl = € (loudia + ]/Q%dx) = Clglig-

O
For convex, polygonal domains  C R?, the constant C is known explicitly.

Theorem 2.5.11. Let Q@ C R? be a convex and polygonal domain. For any function
we H' (Q) with Jowdx =0, there holds the estimate

[
Wllz2@) = — (diam €2) [wlp o) -
For the proof we refer to [180].
Theorem 2.5.11 can be generalized to neighborhoods of convex sets.

Corollary 2.5.12. Let @ C Q* C R? denote two convex and polygonal domains.
Forue HY(Q*), let Tlq (u) := [qudx/|Q|. Then

|M|H1(Q*) .

[2*] | diam Q*
€2

Proof Foru € H' (Q*), let g« (u) := Jo udx/ |Qq+|. The projection property
of ITg leads to
u—TIqu= (I —-Tg) (u—Tg+u),

where [ is the identity. Hence

[Mavllz2@»
lu—Tqu|2 < (1+ sup L@ lu— Morul 2qx) -
veL2(2*)\{0} ||V||L2(SZ*)
(2.95)



2.6 Trace Operators 63

The supremum can be estimated by using the Cauchy—Schwarz inequality for the
L?-scalar product

1 2 1

'Q L N L
) M =g Mzen:

Applying Theorem 2.5.11 to the right-hand side in (2.95) results in

|2*| | diam Q*
_ |u|H1(Q*) .

|M—HQM|L2 Q* S 1+
«Q*) 12

2.6 Trace Operators

The trace (restriction) of a function u € H* () on the boundary 92 can be given
a reasonable definition if the differentiation index of the Sobolev space and the reg-
ularity of the surfaces are both sufficiently large. The main result is summarized in
Theorems 2.6.8 and 2.6.9. The Sobolev norm of the trace of a sufficiently smooth
function u : 2 — C can be estimated by the Sobolev norm of u in a local neighbor-
hood of 9€2. Therefore traces can also be defined for functions that are only locally
in H® (). The relevant space is called H t . (€2). For later applications we will also
introduce the associated dual space H,, (Q) Although norms cannot be defined
on these spaces, a metric and therefore a topology can be defined. We refer to [243]
and [85, pp. 48, 114 ff] for details. However, for our applications we only need the
results given in Theorem 2.6.7, which provides us with criteria with which we can
prove the continuity of mappings from and to these spaces.

Definition 2.6.1. Let 2 be a (possibly unbounded) domain. The space Hlfm (2)

contains all continuous, linear functionals (distributions) on Cgy;,, (€2), in short u €

Camp (R)', with the property that gu € H* () forall ¢ € Camp (€2).

Remark 2.6.2. (a) The definition of the space H loc (2) does not contain any restric-
tions with respect to the growth of the function towards infinity. For example,
every polynomial as well as the exponential function are in H;. (R) for an
arbitrary £ > 0.

loc

(b) By choosing ¢ = 1 we see that for bounded domains 2, H:_ () and H® (Q)
coincide (see Remark 2.3.2).

(¢c) Let Q= C R? be a bounded domain with boundary I :=0Q and QF =
R\ Q. Then the growth of functions from H. (Q+) is not restricted towards

loc

loc
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lnﬁmty However, it is restricted in every bounded neighborhood of T': For u €

HE, (QF) we have uly € HE (U) for every bounded subdomain U C Q7.
(d) In some literature, in the definition of H, loc () the condition ¢ € CZ,, (S2) is
sometimes replaced by ¢ € Cg° (2). In this case, using the conditions in (c),

the growth of the functions in a local neighborhood of T is also not restricted.

In order to define the dual space of Hlf)c (£2), we need to extend the definition of
the support of a function [see (2.74)] to Sobolev functions.

Definition 2.6.3. Let £ > 0. The restriction of a function u € H*¢ () to an open
subset U C  is the zero function u|y; = 0 if

(Ll, W)H((Q) =0

forallw € C* (Q2) with suppw C U.
For £ < 0 the condition (1, ) yr¢(q) = 0 has to be replaced by u (w) = 0.

Definition 2.6.4. Let u € H* (). The support supp () is the largest, relatively
closed set V' C 2 for which u is the zero function on 2\ V.

Definition 2.6.5. Let £ € R and 2 C R? be open. The space H
by

(R2) is given

comp
Comp (RQ):= U {u € Hlf)c (2) : supp (u) C K} ,
K

where the union is taken over all relatively compact subsets K C 2.

Remark 2.6.6. Note that for bounded domains, H:, () coincides with H® (Q)

comp
and HE, ().

Theorem267 (a) For every s € R the bilinear form (-,-) : C*® () x
Comp (Q) - K:

(u, v) =/ uvdx (2.96)
Q

(Q) x H=S (Q) — K.

can be extended to a dual pairing (-,-) comp

loc
(b) Let E be a normed space. A linear mapping A : Comp () — E is continuous
if and only if the restriction A : {u € Hf_ (2) :supp (1) C K} — E is con-
tinuous for all compact sets K C Q. A llnear mapping A : H} (Q) — E is
continuous if and only if there exist ¢ € C, (R2) and a constant C < oo such

that

comp

lAullg < Clloullgs@) — Vu € Hige ().

(c) A linear mapping A : E — H}_ () is continuous if and only if for all ¢ €

Ceomp (82) there exists a C < 00 such that

e (A sy = C llullg VueE.
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(d) A linear mapping A : HCSOmp (RQ) — Ht . () is continuous if and only if for all
compact sets K C Q andall p € C (Q) there exists a C < oo such that

comp

lo (AW e @) < C llullgs @) Yu € H,p, (S2) : supp (u) C K.
(e) A linear mapping A : loc (Q) — HL.(Q) is compact if and only if for all
cut-off functions ¢,y € C2 (S2) the restriction u — @A (Yu) : H® (2) —
H' (Q) is compact.

comp

Theorem 2.6.8. Let Q™ be a bounded Lipschitz domain with boundary I' and
Qt = RIN\Q.

(a) For 1/2 < £ < 3/2 there exists a continuous, linear trace operator yqy
HE, (RY) — HSV2(T) with

loc

Yo = ¢ |r forallp € C° (]Rd).

(b) For s € {+,—} there exist one-sided, continuous, linear trace operators y; :
HE (Q°) — HY2(T) with

Yoo = ¢ |r forall g € C°(Q¥)

and
y(;L U ="y, U=YolU almost everywhere

forallu € HE, (RY).

loc

This result can be generalized for smoother domains.

Theorem 2.6.9. Let @~ C R? be a bounded C*-domain, k € NU {oo} and

Qt = RI\Q~. Let the differentiation index { satisfy the condition 1/2 <

{ < k Then the trace operator from Theorem 2.6.8 is a continuous operator
H. (]Rd) — HYV2(T) which satisfies the property

g =¢lr  VYoeC& (]Rd),

The proof is based on a localization of the statement with the help of a C¥ or
C %1 atlas of T" and a subordinate partition of unity. In doing so, the trace theorem
can be reduced to a trace theorem in the half-space and can then be proven by
characterizing Sobolev norms in terms of Fourier transforms (see [162] and [72]).
A direct result is the fact that the trace of a function is solely determined by its local
behavior in a neighborhood of T".

Remark 2.6.10. With the same conditions as in Theorem 2.6.8 we have for all v €
Hlf)c( d), 1/2 < £ < 3/2, and all cut-off functions y € Cg° (]Rd) that satisfy
x = 1 in a neighborhood of '
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Yo (Xv) = vo (v).

Forvt e Hlf)c (§2+) and v~ € Hlf)c (R27) we have

Yo (0vT) =vd (vF) and vy Gv) =y5 (7).

The trace theorem answers the question under which conditions functions from a
Sobolev space H* () can be restricted to surfaces I'. It turns out that this is possible
for sufficiently smooth surfaces. Furthermore, the differentiability is reduced by half
an order.

There are a number of applications in which the inverse of this question plays
a significant role. Can functions from H‘~'/2 (I"), that are given on surfaces, be
extended to H (Q)?

Theorem 2.6.11. Let 2~ be a bounded Lipschitz domain with surface I' and
QT := RI\Q~. Then for 1/2 < £ < 3/2 there exists a linear, continuous extension
operator Z : H"1/2(T') - H¢ (Rd) with (yo 0 Z) () = ¢ on HV/2(T).

comp

ForQ e {Q_, Q+} the composition

Za = RoZ:H"'2(T) > H. (Q)

comp

is continuous. Here, Rq denotes the restriction of a function in H fomp (]Rd ) to Q.

The proof is given in, e.g., [242, Theorem 8.8].
Notation 2.6.12. Alternatively, Zq+ is denoted by Z 1 and Zq—- by Z_.

2.7 Green’s Formulas and Normal Derivatives

Classically, elliptic boundary value problems consist of a differential equation for
the unknown function on the domain 2 and associated boundary conditions. We
formulate the Laplace problem with Dirichlet boundary conditions as a prototype
for a linear elliptic differential equation: Let / € C°(Q) and gp € C°(T) be

given. Find u € C? (Q) N C° () such that
—Au=f inQ, u=gp onl. 2.97)
In general, for equations of second order, either the trace or the normal derivative
of the unknown function is given on the boundary.
In this section we will define the conormal derivative to the general linear, elliptic

differential operator with constant coefficients. This operator has the form

Lu := —div (A gradu) + 2 (b, gradu) + cu, (2.98)
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where we generally suppose that A € R4* is positive definite, b € R¢ and ¢ € R.

The smallest eigenvalue of A is denoted by ap,i, and the largest by an,«. We always
assume that we have
0 < Amin < Amax < 00. (2.99)

The Laplace problem (2.97) results if we choose A =I,b =0and ¢ = 0.

In order to define the conormal derivative we will multiply the operator L in
(2.98) by suitable functions and integrate by parts over 2. The equations that
result from this are called Green’s formulas and also form part of this chapter. Let
L (T) := (L* (T)“.

Theorem 2.7.1 (Rademacher). Let Q2 be a bounded Lipschitz domain with bound-
ary I'. Then there exists an outer normal vector almost everywhere on I which
satisfies m € L (T).

A proof of this theorem can be found in, e.g., [241, 11A, p.272]. Next we will
introduce some conventions which will be used frequently.

Convention 2.7.2. Let Q™ be a bounded Lipschitz domain with boundary T" and
let Q1 := RI\Q~. We assume that each of these domains is connected and, fur-
thermore, that the orientation of the normal field n : T' — S;_1 is chosen in the
direction of Q. In the following Q denotes one of the domains Q~, Q7, and the
algebraic sign function og is given by

oo 1 forQ2=Q",
2721 forQ = Q.

Therefore oqn is the outer normal relative to Q.

The principal part of the operator L in (2.98) is given by div (A grad -). Gauss’
theorem deals with integration by parts of integrands in “divergence form”.

Theorem 2.7.3 (Gauss’ Theorem). Let Q € {Q~,Q*}. ForallF € H' (Q,R%)
we have

/(divF)dx:[(agn,F) dsy.
Q r

The proof can be found in, e.g., [162, Theorem 3.34, Lemma 4.1]. A direct result
of Gauss’ theorem is the first of Green’s formulas.

Theorem 2.7.4. Let A € R?*4 be symmetric and positive definite. Then we have
forallu € H? () andv € H' (Q) Green’s first formula

/ div (A gradu) vdx = —/ (A gradu, gradv) dx + OQ/ (An, grad u) vdsy.
Q Q

: (2.100)
Forv € H? (Q) one obtains Green’s second formula
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/ div (A grad u) vd x— / udiv (A gradv) dx
Q Q

= 0q (/ (An, grad u) vdsg —/ u (An, grad v) dsx) .
r r

(2.101)
A proof can be found in, e.g., [162, Chap. 4].
Foru,v € H' () we can define the sesquilinear form
B (u,v) = / ((A gradu, gradv) + 2 (b, grad u) v + cuv) dx (2.102)
Q
and for u € H? () we can define the conormal derivative
y1u = (An, yo grad u) . (2.103)
A direct consequence of (2.100) is the representation
[ (Lu)vdx = B (u,v) — og / (y1u) (yov)dsx (2.104)
Q r
forallu € H?(Q) andv € H! (Q).
The formal adjoint operator of L is given by
L*v := —div (A gradv) — 2 (b, gradv) + cv. (2.105)

The term “formal adjoint” refers to the property (whose proof is achieved by means
of integration by parts)

(Lu, V)Lz(Rd) = (M, L*V)LZ(]Rd)
for all u,v € C*® (Rd) which have the property that one of the two functions u, v

has compact support. In general, this relation does not hold for bounded domains.
Through integration by parts we have the following representation

/ u(L*v)dx = B (u,v) — og / (you) (F1v)dsy (2.106)
Q r

forallu € H' () and v € H? (Q) with the modified conormal derivative
y1v := (nyg, A gradv + 2bv) = y1v + 2 (b, n) yov. (2.107)

Remark 2.7.5. The boundary differential operators yy and ¥ are continuous map-
pings from H? (Q) to H'? (I).
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The formulas (2.104) and (2.106) are called Green’s first formulas for the opera-
tor L. The domain of the conormal derivatives y; and ¥7 can, for s > 1, be extended
to the space

HS (Q) = {u € H}

loc

(Q): Lue L2 (sz)} (2.108)

comp

by using the relations (2.104) and (2.106).

Definition 2.7.6. Let 2 € {Q_, Q+} be as in Convention 2.7.2 and let Zg be
the extension operator from Theorem 2.6.11. Then the (weak) conormal derivative
Y1 Hi (Q) — H~Y2(T) is characterized by

(1 ¥) 2y = 00 (B (. Zay) — (Lu, Za) o) V¥ € H2(D).
(2.109)
The modified (weak) conormal derivative 77 : H} (@) — H~"/2 (') is given by

W 72y = 0a (B (Zavv) = (Za¥, L") o)) V¥ € HY2 (D).

Theorem 2.7.7. Let Q € {Q_, Q+} be as in Convention 2.7.2. The conormal
derivative Y1 : Hi (Q) — H™Y2 () is continuous. Let u € Hi (Q),ve Hl(l)C ()
and let one of the two functions u, v have compact support, then

(Y1, yov) 12y = 00 {B (0, v) — (Lu,v)12q)} - (2.110)

Foru € H? (), y1u coincides with the conormal derivative from (2.103) almost
everywhere on T'.

The modified conormal operator 7 : Hi () — H~Y2(T) is continuous. Let
v € Hi (Q), u € H}. () and let one of the two functions u,v have compact
support. Then

(You, Y1v)12(r) = 0@ {B (u,v) — (u L*V)Lz(g)} . (2.111)

Forv € H?(RQ), y1 coincides with the modified conormal operator defined in
(2.107) almost everywhere on T.

A proof of this theorem can be found in [162, Lemma 4.3].

Theorem 2.7.7 implies that the definitions of y; and 7 are independent of the
choice of the trace extension Zgq. In order to see this we consider another continuous
trace extension Zg : H/2(I') — H! (). Foru € H} (Q2) we define g := yqu

comp

as in (2.109) and we define g by replacing Zg in (2.109) by Zgq. Then

(& V)12 = 00 (B (u ’z};w) - (Lu, %W)LZ(Q)) vy e HI2(T).
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For € H'Y2(I") we define v := Zqy and ¥ := %w and note that ygv =
yov = ¥ (see Theorem 2.6.11).In (2.110) we set Yiu =g, yov = Yandv = Zgw
From this we subtract (2.110) while setting yju = G, )/OV = ¢ and V= ZQI//
and thus we obtain

oQ(g&—& V)2 =B (H (ZQ - %) 1/f) - (Lu, (ZQ - %) 1/f)
e (g, Yo (ZQ - %) W)LZ(F) =

Since ¥ € H'Y2(I') was arbitrary, we have as a consequence g = g. The
corresponding result for 3] can be proven analogously.

Corollary 2.7.8. Let u € Hl{ (2). Then, for every cut-off function y € C§° (]Rd)
that satisfies y = 1 in a neighborhood of T, the equation y1 (yu) = y1u holds.

Proof. Let U be a neighborhood of I" with y = 1 on U. We choose a second cut-off
function y» that satisfies supp y2 C U and y» = 1 in another neighborhood U,
of I". We define % = y2Zgq and y u in (2.109) by using % instead of Zg. (The
definition of y;u is independent of the choice of the trace extension, as was shown

above.) By using y = 1 on supp (%(p) we obtain for all ¢ € H/2 ()

(Yiu. @) 2ry = 0 {B (“ ZQ“’) N (L”’ ZW)LZ(Q)}

=oq B (yu.Zay)—(Lyu,Zgy = (1 (W, o) 2y -
L2(Q)
O

Remark 2.7.9. The definition of the conormal derivative depends only on the prin-
cipal part of the operator L from (2.98), since the sum of the terms of lower order
on the right-hand side in (2.110) equals zero [see (2.102)].

Remark 2.7.10. In order to distinguish whether yy is applied to functions in QT or
Q~, we write y;t, yi or v, ﬁ Analogously, the notations By (-,-) and B_ (-,-)
indicate whether the sesquilinear form B is defined with respect to Q™ or Q.

Remark 2.7.11. By combining the formulas (2.110), (2.111) for the two functions
u,v € H i (), one of which has compact support, we obtain Green’s second
formula

(Lu,v) 2@y = (. L) 12 gy = 0@ {(Yout, 1) L2(r) — (V1. Yov) 2ry - (2.112)

Green’s third formula appears in connection with transmission problems. Here

the goal is to find a function u whose restrictions u™ := u|g+ and u™ = u|g—

satisfy the equations
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Lut = f+ inQ*

Lu = f~ in Q7.
Apart from this, the behavior of the traces of u™ and ™ has to be prescribed on the
boundary I'. In the remainder of this section we will derive a Green’s representation
formula which is relevant to the study of this question.

For u € L? (R?) we first introduce the abbreviations ut := u|g+ and u™ :=
|- in order to define the space

H} (Rd\r) = {u € L2 (]Rd) |ut e HL (%) A w” e H] (sz—)}, 2.113)

where the spaces H} (27), H} (§2+) are given as in (2.108).

Remark 2.7.12. In general, for a function u € Hl{ (Rd\I‘), we do not have Lu €
L? (Rd). An easy counter-example is obtained by setting u™ = 1 and u™ = 0.

Foru € Hi (Rd\F) the function Lyu € L? (Rd) is defined as

Lu” inQ~

L = .
+ Lut in QF

(2.114)

For a given f € Lfomp (Rd) we now consider functions u € H} (Rd\I‘ ) that
satisfy
Liu=f  inR\T. (2.115)

Forue H 11‘ (Rd \I ) the application Lu can be defined as a functional (distribution)
on C§*° (]Rd)

(L) 2 (ray = (L) o (ay Vv € CSF (Rd) . (2.116)

We use u € L2 (R?), L*v € C§° (R?), (2.111) and (2.110) to maintain the separa-
tion

(L, V) 2 () = > (1, L) 2y = > (Bs (u,v) — oq (Vguv;’?")wr))

s€{+.—} se{+,—}
(2.117)
= (Lguv)p(may+ ) O ((J’i"% Yov) oy — (Véuy Vf'V>L2(F))
s€{+.—}
(2.118)

on the right-hand side in (2.116). The traces and conormal derivatives of u are,
in general, discontinuous across the boundary I". As an abbreviation we use the
following notation
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U] ==y u—you and [yiu] =y 'u—y u (2.119)

The smoothness of v € Cg° (Rd) implies [¥1v] = [v] = 0 and therefore (2.118)
implies the equation

(LM»V)Lz(Rd) = (/. V)Lz(Rd) + (U], Viv) 2y — (vaul  vov) 2y (2.120)

forallu € H} (Rd\F) andv € Cg° (Rd).

By using the dual mappings of 71 and yp, (2.120) can be expressed with-
out the use of test functions. Theorem 2.6.8 implies that the trace mapping yo :
H}. (RY) — H'/2(T) is continuous and that the dual mapping y{, : H~/2(T') —

loc

H3L (R9) is characterized by

comp
07002y = (1) oy Vv € Hibe (RY)we HTV2 (D). 2121)
For functions v € C*° (Rd) the modified conormal derivative can be written as

y1v = (nyp, A gradv + 2bv)

and we have y7v € L™ (I"). As a consequence, 71’ can be defined on (L (T'))’ =
L' (T) by

(W, ﬂV)L2(F) = (ﬁ’w, V)Lz(Rd) VYw e Ll (F) s S COO (]Rd)

and therefore y1’w describes a functional on C (Rd). With this result and (2.120)
we obtain the third of Green’s formulas

Lu= f + 91" ([ul) — yo ([y1ul) (2.122)

forue H} (Rd\F) as a functional on C¢° (Rd).
The derivation of (2.122) can be done in complete analogy for u € H i (]Rd)
with compact support and v € C* (]Rd).

Proposition 2.7.13. Ifu € Hi (]Rd\l") has compact support, (2.122) still holds
when considered as a functional on C* (Rd).

2.8 Solution Operator

Let Q2 be a bounded Lipschitz domain with L as in (2.98). Then the modified
differential operator L can be defined by

L:=L+2, (2.123)
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where A > 0 will tl(j, determined at a later stage. B (-, -) denotes the sesquilinear form
from (2.102) and B = B + A (-,*) 2(q)- For given boundary values ¢ € HY2 ()
we consider the homogeneous Dirichlet problem: Find u € H! () with you = ¢
and "

Bu,v)=0 VveH; (Q). (2.124)

Proposition 2.8.1. Every solution of (2.124) that satisfies u € Hi (2) solves the
homogeneous equation "
Lu=0 in Q. (2.125)

Solutions of (2.125) are called L-harmonic.
Proof. From Lu € L2 () andu € L2_(R2) = L? () (see Remark 2.6.2.b) we

comp loc

have Lu = Lu+ Au € Lfomp (£2) and therefore u € H]% (£2). By using (2.110) with
L < L and yov = 0 forall v € H{ (S2) we obtain the assertion. O

By using the trace extension Zg from Definition 2.6.11 the problem (2.124)
can be transformed into an inhomogeneous Dirichlet problem with homogeneous
boundary conditions. We set u; := Zq¢ and ug = u — u;. We apply this approach
in (2.124) and thus obtain the equation that determines ug: Find uo € HO1 (2) with

B (up.v) = —B (u1.v)  Vve H! (Q). (2.126)
We will show in Lemma 2.10.1 that
2 2
Re B (u,u) = ¢ ”u”Hl(Q) -C ”u”LZ(Q)

holds with constants ¢ > 0, C € R that do notdependonu € ﬁ& (€2). The choice of
A > C therefore implies that the modified sesquilinear form B is elliptic in H (2).
We will also prove the continuity in Lemma 2.10.1. According to the Lax—Milgram
lemma (Lemma 2.1.51) problem (2.126) has a unique solution ug, which satisfies
the inequality
luoll (@) = € lurllpi(g) -

By using the continuity of the extension operator (see Theorem 2.6.11) one can
deduce that

lul 1@y = luollmi@) + g = A+ C) 1 Ze@llai) = C llellaizr)-
With these results, the existence of a continuous solution operator 7" : H 1/2(I) —»

H' () that maps the Dirichlet data ¢ € H'/?(I") to the solution u of problem
(2.124) has been shown. It satisfies

1T 1 (@)y—m172(r) < C.-

Since LTu = 0 the mapping T : HY?(T) — H} (Q) is also continuous. It
follows from the mapping properties of 7 that the operator y; T is well defined.
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This operator maps the trace of an L-harmonic function to its conormal derivative
and is called Steklov—Poincaré operator. The mapping properties of y; and T imply
that

nT :HY?> (@) > H™ V2 ().

This result can be generalized to a larger scale of orders of differentiation.

Theorem 2.8.2. Let Q2 be a bounded Lipschitz domain. Then for —1/2 <s < 1/2,
both the Steklov—Poincaré operator

le . H1/2+S (I‘) — H—1/2+S (I‘)
and, for —1/2 < s < 1/2, the solution operator T
T : H1/2+s (F) s H1+s (Q)

are continuous.

A proof of the first assertion can be found in [166, Chap.5, Theorem 1.3,
Lemma 1.4] (see also [72, Lemma 3.7] or [162, Theorem 4.25]). The second
assertion is proven in [72, Lemma 4.2].

The solution operator allows us to show that the conormal operator is also
continuous for a scale of Sobolev spaces.

Theorem 2.8.3. We use the notations from Convention 2.7.2. The conormal trace
operators

yr H3TH(QT) - BTV (),
yi HIPH(QY) > HSTV2 (D)
are continuous for —1/2 <s < 1/2.

Proof. Due to Remark 2.7.9 we only need to consider the case Lu=—div (A grad u).

We begin by considering the interior problem. For u € H Ll (R7) and ¢ €
Hlf (T') we set v := T¢. We then use Remark 2.7.11 in which we replace L
by L. With L* = L, LT¢ = 0 and ﬁ = y; we get

()/I_M, (/’)Lz(p) = (J/OM, VI_T(/))LZ(F) - (LM, T(/))LZ(Q—) . (2127)
By using the dual operators 7’ and (y;T)" we obtain the representation
ro=01T) r-TL

To obtain the first assertion we combine yo : H 5 (Q7) — HY2*S(I') with

loc

(1 T) : HY/2+s(T) - HS~1/2(T). For the second term we use L : H} T (@)
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- L2(Q7), L2 (Q) C (Hl_s (Q_))/ forall —1/2 < s < 1/2 with a continuous
and dense embedding and finally 7" : (H '~ (Q_))/ — H™1/2+s (D),

The continuity of y1+ for the exterior problem is proven by localization (see The-
orem 2.6.7b). Let y; € CX° (§2+) be an arbitrary cut-off function that is equal to 1

comp

in a neighborhood of I'. We need to show the following:
lvi Geaw) |}HS,1/2(F) <C ||)(1w||Hi+1(Q+) vwe HiPH(QT). (2.128)

We choose a sufficiently large, open ball Br with
supp x1 U Q™ C Bg.

Let yo € Cg° (Rd) be another cut-off function with supp y» C Bg and y2 = 1 on

Supp x1-
We set Q}f := Br N Q7 and define the solution operator 7 with respect to the

Lipschitz domain Q; with prescribed boundary conditions ¢ € H'/? (") and zero
boundary conditions on dBp.

As before, we choose ¢ € H'/2(I") and in this case set v := y»T¢. For an
arbitrary w € H} (1) we define u := y;w and observe that u,v € H} (Q7).

It should be noted that, taking Remark 2.7.11 into consideration, the traces of
u and v are zero on the outer boundary dBg. Furthermore, we have

(M,Z*V)LZ(Q+) = (XlW,Z(XzT@)Lz(QwL) - (Xlw’z(XZT‘D))LZ(Q*ﬂsuppm)
= (nw. ZT‘/’)L2(Q+ﬂsupr1) =0

and
(Z“’V)Lz(sﬁ) = (Z”’ T‘/’)LZ(Q+msupr1) = (Z”’ Tw)Lz(Q;r) = (T,Z”’ g")LZ(F)'
By Remark 2.7.11 we then obtain
(ri"u. VO")L2(F) = (vou. 7y’ (XzT‘/’))LZ(r) + (T/Z”"/’)LZ(F)'
By using y;" x2T¢ = y; T (see Corollary 2.7.8) we obtain the representation
yiiu= T'Tu+ (v )/ You

as a functional on H'/2 (T). In the same way as was done for the interior problem
we can now deduce the estimate (2.128) for u = yw. O

In order to prove the mapping properties of boundary integral operators we
will need dense subspaces of the Sobolev spaces H® (I'). The relevant results are
summarized in the following lemma.
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Lemma 2.8.4. We assume the same conditions as in Theorem 2.6.8:

(a) The trace mapping yo maps Cg° (Rd) to a dense subspace of H'/? ().
(b) The trace mapping (yo, y1) maps Cg° (Rd) to a dense subspace of H'/? (T") x
H~'/2(T).

The proof can be found in, e.g., [72, Lemma 3.5].

2.9 Elliptic Boundary Value Problems

We introduced boundary value problems for the Laplace operator in Chap. 1. In this
section we will treat the boundary value problems related to the operator

Lu = —div (A gradu) + 2 (b, gradu) + cu

[see (2.98)]. In general, we will assume that the space is of dimension d = 3.
The trace and conormal operators Y, 1 on the boundary I' of a bounded Lips-
chitz domain @~ C R3 were introduced in Theorem 2.6.8 and (2.103) as well as
Definition 2.7.6.
For sufficiently smooth functions u € C°(Q) and v € C' (Q) these can be
written as
you = ulp and y;v = (An, (gradv)|p).

2.9.1 Classical Formulation of Elliptic Boundary Value Problems

First we will present the classical (or strong) formulation of elliptic boundary value
problems, after which we will introduce the relevant variational formulations. We
will use the notation from Convention 2.7.2.

2.9.1.1 Interior Dirichlet Problem (IDP)

For a given f € C°(Q7)and gp € C°(T) findu € C?(Q7) N C°(R7) such
that
Lu=f inQ7,

2.129
u=gp onl. ( )

2.9.1.2 Interior Neumann Problem (INP)

Foragiven f € C°(Q7)and gy € CO(T) findu € C2(Q7) N C!(Q7) such
that
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Lu=f inQ7,

2.130
yiu=gn onl. ( )

2.9.1.3 Interior Mixed Boundary Value Problem (IMP)
Let T" be partitioned into relatively open, non-empty subsets I'p and 'y, i.e.,
'=TpUTly, IpNIy=0,

where we assume that the surface measure |['p| > 0. For a given right-hand side
f € C°(227) and boundary data gp € C°(T'p) and gy € C°(T'y), find u €
C2(Q)NC%°(Q7)NC'(Q™ UTy) such that

Lu=f inQ~,
u=gp onlp, (2.131)
yiu=gn only.

2.9.1.4 Exterior Dirichlet Problem (EDP)

In order to formulate the exterior boundary value problem one needs to prescribe the
boundary conditions on I' as well as the behavior of the solution at infinity. For the
strong formulation we will only present these decay or radiation conditions, which
depend on the coefficients of the differential operator L, for the case ¢ > 0 [see
(2.98)] and for the Helmholtz equation.

Let ¢ > 0 for the coefficient ¢ in L. Then the decay conditions are given by

lu(x)| < C |x||”" for ||x| — oo. (2.132)

We consider the Helmholtz operator Lu = —Au — k?u and a positive wave number
k > 0. For these we impose Sommerfeld’s radiation conditions

lu®)| < C x|

u for ||x|| — oo. (2.133)

— —iku| < C ||x||”?
or

Here du/dr = (x/ ||x||, Vu) denotes the radial derivative.

The radiation condition (2.133) describes outgoing waves. Time-harmonic
incoming waves can be described analogously. In this case in (2.133) k is simply
replaced by —k.

Foragiven f € C°(Q%)andgp € C°(T) findu € C>(QT)NC?(QTUT)
such that



78 2 Elliptic Differential Equations

Lu=f inQt,

u=gp onl,

(2.132)  ifc >0,

(2.133)  for the Helmholtz problem.

(2.134)
u satisfies

2.9.1.5 Exterior Neumann Problem (ENP)

For a given f € C°(Q%) and gy € C°(I) findu € C2(QT) NCH(QTUT)
such that
Lu=f inQT,
ViU = gnN onl,
2.135
(2.132) ifc >0, ( )

tisfi
1 SAUShes (2.133)  for the Helmholtz problem.

2.9.1.6 Exterior Mixed Boundary Value Problem (EMP)

Let I" be partitioned into relatively open, disjoint, non-empty subsets I'p and 'y,
ie.,
'=TpUTy and |Ty|>0, |Tp|>0.

For a given right-hand side f € C° (Q"’) and boundary data gp € C°(I'p) and
gy € CO(Iy) findu e C2(QT)NCO(QT UTp)NC! (21 UTy) such that

Lu=f inQt,
u=gp onI'p,
Yiu = gnN on 'y, (2.136)

(2.132) ifc >0,

tisfi
u satishes (2.133)  for the Helmholtz problem.

2.9.1.7 Transmission Problem (TP)

Finally, we want to formulate the transmission problem. The differential equation is
considered in both the interior and the exterior domain and appropriate transmission
conditions are imposed on the common boundary I' = Q" = dQ~. The differ-
ential operators in the interior and exterior domain need not be the same, which is
why we denote the differential operator in the interior domain by L™ and for the
exterior domain QT by LT. The relevant coefficients for s € {—, 4} are denoted by
A%, b%, 5.

For a given right-hand side f = (_f_, f+) with f* € C%(Q°) fors € {—, +}
and transmission data gp € C°(I'p), gy € C°(T'y), the aim is to find u =
(u,ut) withu® € C?(Q¥) NC! (Q* UT) for s € {—, +} such that
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Lu® = f* in Q° fors € {—, +}
[u] = gp onT,
riu] =gn onT, (2.137)
u™ satisfies (2.132) ifc = 0,

(2.133)  for the Helmholtz problem.

2.9.2 Variational Formulation of Elliptic Boundary
Value Problems

One of the decisive disadvantages of the strong formulation of boundary value prob-
lems is that questions concerning existence and uniqueness cannot be answered in
a satisfactory way. We can overcome these difficulties by choosing a variational
formulation in appropriate function spaces instead. In order to do this we multiply
the differential equation by a test function and then integrate over Q2. If we then
use integration by parts, the boundary conditions can directly be incorporated in
the variational formulation. The solution of the variational problem is called a weak
solution. In contrast to the strong formulation, the solutions are either sought or
given in Sobolev spaces. We will show in Sect. 2.9.3 that if the solution to the vari-
ational problem is sufficiently smooth, it coincides with the classical solution. We
briefly review the formal definition of the sesquilinear form B from (2.102), which
will appear in the variational formulation

B (u,v) = / ((A gradu, gradv) + 2 (b, grad u) v + cuv) dx.
Q

For some of the boundary value problems that are to follow, the coefficients A, b
and ¢ will have to satisfy additional conditions.

2.9.2.1 Interior Dirichlet Problem (IDP)
First we suppose that the function u in (2.129) is sufficiently smooth. More specif-
ically, this means that u € H} (Q7) and therefore f € L? (7). We multiply

(2.129) by the functions v € Cg° (27) and integrate over 7. The conditions we
imposed on u and v allow us to apply Green’s formula (2.110)

B (u,v) — (yiu, yov) 12(ry = (fiV) 20— -
If we set yov = 0 we obtain

B (u,v) = (fV) 2@ Yve Hy (7). (2.138)
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Since
F @) =(fv)2@) (2.139)

the right-hand side in (2.138) defines a functional on HO1 (27). Equation (2.138) is
also valid for functions u, v € H! (7). This leads us to the

Variational formulation of the interior Dirichlet problem (2.129): For a given
FeH ' (Q )andgp € HY/2(T) findu € H' (™) with Yo 4 = gp on I' such
that

B (u,v) =F (v) Vv e Hy (Q7). (2.140)

Solutions of (2.140) that are not in C? (Q7) are called weak solutions. Con-
versely, solutions that are in u € C?(Q7) N Hy (27) are called strong solutions.
By using the trace extension Z_ (see Remark 2.6.12) the problem can be formu-
lated as a homogeneous Dirichlet problem. We set u; := Z_gp and suppose that
u = ug + u;. Then the unknown function ug is the solution to the problem: Find
up € Hy (7) such that

B (ug,v) = F (v) — B (u1,v) Yve Hy (7). (2.141)

2.9.2.2 Interior Neumann Problem (INP)

In the case of Neumann boundary conditions it is not the trace but the conor-
mal derivative of the solution that is given. Therefore we use the function space
H' (7). We then multiply by a test function and apply Green’s formulas which
gives us

B (u,v) = F (v) (2.142)
forall v € H' (Q7). In general, F is a given functional from (H1 (Q_)),. If the
boundary data in (2.130) is given, with f € (H1 (Q_))/ and gy € H™'/2(I), the
associated functional is given by

F )= (V)2 + €N, Yov) L2y - (2.143)

2.9.2.3 Interior Mixed Boundary Value Problem (IMP)

In the case of the mixed boundary value problem, the trace of the solution is given on
the Dirichlet boundary I'p C T" with |I'p| > 0. This fact is the motivation behind
the definition of the Sobolev space

HL(Q7):={ve H' (Q7):v=0o0nT)p in the sense of traces} .

Again we multiply the differential equation by test functions v from H é (27) and
integrate over 2~. By applying Green’s formula (2.110) we obtain
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B (u,v) = (fv)p2@—) + (V1. Yov) L2(r) -

Since v vanishes on I'p and y;u = gn on I'y, we obtain

(yiu, yov) r2(ry = (N> YoV) L2(Ty) -

The variational formulation for the interior mixed boundary value problem reads:
Find u € H! () with you = gp on I'p such that

B (u,v) =F (v) Yve Hp(Q). (2.144)
For given data f € (Hé (Q)), and gy € H™Y/2(I'y), F is defined by
F )= (fv)r2@@-) + (8N YoV L2(ry) - (2.145)

By using an arbitrary trace extension u; € H'(Q),ie., you; = gp on I'p, we
can apply the approach u = ug + u;. The function uy is the solution of the equation
with homogeneous Dirichlet boundary conditions: Find uy € H ll) (27) with

B (ug,v) = F (v) — B (u1,v) Yve H)(Q). (2.146)

2.9.2.4 Function Spaces for Exterior Problems

We now move on to exterior problems. In principle we approach the problem in the
same way as for interior problems. However, now we have to consider the decay
conditions, which have to be formulated within the definition of the function spaces
in a suitable way. We achieve this by introducing suitable weight functions in the
definition of the Sobolev spaces. These characterize the behavior of the functions at
infinity and depend on the differential operator L under consideration. The notation
H! (L, §2+) makes this dependency evident. The applied weight function should,
on the one hand, guarantee the existence and uniqueness of the solution of the vari-
ational problem. On the other hand it should also imply that the weak solution
also solves the strong formulation of the boundary value problem, possibly after
imposing certain conditions on the smoothness. In the following we will specify the
relevant function spaces for the general differential operator with a positive reaction
component (¢ > 0) and for the Laplace and Helmholtz operators. The variational
formulation requires different trial and test spaces for the Helmholtz problem. The
trial space will always be denoted by H'! (L, 2) and the test space by H% (L, ).

General Differential Operator with ¢ > 0

If, in the general differential operator L from (2.98) the component ¢ > 0, then the
weighted and non-weighted Sobolev spaces coincide:
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H'(L.Q@"):=H"(Q") and H(L.QT):=Hj(QF).

We define the norm appropriately ||-||H1(L,Q+) = (-, -)ZIZ(L’QJr) with the usual
inner product

(u,v)Hl(L’QJr) = /Q+ (Vu, Vv) + uv) dx. (2.147)
The trial and test spaces coincide: |||l g1 (L o+) == I'llz1(L.a+)- H} (L,QT) =

HY (L, Q%) and H} o (L, Q%) = HE (L, 2F).

Laplace Operator

The differential equation for the Laplace operator L = —A leads to the Poisson
equation
—Au=f inQT.

For sufficiently smooth functions u,v € C:3,, (27) [see (2.75)] we can define the
inner product

W) g1 (Lt = /m ((Vu, V) +#) dx (2.148)

as well as the norm ||“||H1(L,sz+) = (u, ”)le(L a+) For L = —A the weighted

Sobolev spaces H' (L, Q%) and Hy (L.Q%) are given by the closures of the

spaces Con, (Q+) and Cg° (Q+) respectively, with respect to the norm

””Hl (L,Q+) in (2148)
The trial and test spaces coincide for the Laplace problem: ||| HL(Lat) =

Ml gy HE (L) = HY (L.Q%) and HE, (L.QF) = H (L.Q7).

Remark 2.9.1. Since H' () Cc H' (L, Q") in the case of the Laplace operator,
one could also formulate the exterior boundary value problem in H'! (§2+) How-
ever, as functions that satisfy the classical decay conditions (2.132) in general are
not in H'! (Q+) the solutions of the variational problem would be “unphysical”.
In contrast, the space H! (L, Q+) allows for solutions with a physically correct

behavior O <||X||_1)f0r x| = oc.

For aminc > ||b||? [see (2.99)] the physically relevant solutions show exponential
decay for ||x|| — oo (see Lemma 3.1.9) and so the Sobolev space H! (Q+) can be
used for the formulation of the relevant variational problem.

Remark 2.9.2. For every bounded, open domain o C Q7T the spaces H' (L, )
and H' (w) coincide as sets and the norms are equivalent. We have the same
assertion for the spaces HO1 (L,w) and HO1 (w).
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Helmbholtz Equation
The Helmholtz equation is given by

Liu:=—-Au—k*u=f inQ*.

Let p(r) := 1 4+ r? and p := p~!. For sufficiently smooth functions u,v €
Ceomp (27) the inner product can be defined as
(Vu, Vv) + uv (au ) ) (Bv } )
’ — o= -k — — ik dx
(u V)p,Hl(L,Q+) /;2+ ( o (XD P iku o ikv
(2.149)

L . 1/2
(see [154,170]). The norm is given by ||”||H1(L,sz+) = (u,u)p’Hl(L,QJr). The

weighted Sobolev spaces H' (L, Q%) and Hy (L, Q%) are the closures of the
spaces CX° (Q+) and Cg° (Q+) respectively, with respect to the norm

comp

||'||H1(L,Q+) .
The associated test spaces H} (L,Q"’) and H}O (L,Q"’) are the closures
of the spaces C2 (1) and C$° () respectively, with respect to the norm

comp

L 1/2 . 1/2
||u||H71~(L,Q+) = (M, u)H}(L,Q"') = (Ll, u)ﬁ,Hl(L,Q+)'

Remark 2.9.3. We have introduced the weighted Sobolev spaces

comp

H! (L,Q+) — C—OO (Q+)\I-I|H1(L,Q+) and H01 (L,Q+) - W“‘HH‘(LQ‘F)

i} (1.2) = Cap @) 05w by (Lo¥) = G @) )
for the general differential operator L from (2.98) with ¢ > 0, as well as for the
Laplace and Helmholtz operators. The norms are the square roots of the inner
products from:

e Equation (2.147) for the general differential operator L from (2.98) with ¢ > 0
e FEquation (2.148) for the Laplace operator
e FEquation (2.149) for the Helmholtz operator

2.9.2.5 Exterior Dirichlet Problem (EDP)

Let L again be the general differential operator from (2.98) with ¢ > 0 or the
Laplace or Helmholtz operator and let H ! (L, Q+), Hj} (L, Q+) and H|} (L, S2+),
H}’O (L, Q"’) be as in Remark 2.9.3.

We obtain the variational formulation of the exterior Dirichlet problem by mul-
tiplying the differential equation in the strong formulation (2.134) by test functions
v € C§° (21). We can apply Green’s formula (Theorem 2.7.7) under the condition
thatu € H} () and we then have
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B(u,v):/ fvdx.
Q+

The sesquilinear form B can be extended to H' (L, Q%) x H},o (L,Q%). The

variational formulation of the exterior Dirichlet problem then reads: Let F €
!/

(H}O (L,Q+)) and gp € H'Y2(T) be given. Find u € H'(L,Q") with

u = gp on I" such that

B u,v) = F (v) Vve Hpy(L.Q). (2.150)
If we consider the strong formulation (2.134) the functional F is defined as
F )=/ V)2a+)- (2.151)

Here we assume that f is sufficiently smooth, so that the right-hand side in (2.151)
exists forall v € Hj (L, Q™).

We can also transform this problem into one with homogeneous boundary con-
ditions by applying a trace extension. We do this by choosing a function u; €
H'(L,Q) with u; = gp and by then applying the approach u = ug + u;. The
unknown function ug is then the solution of the homogeneous Dirichlet problem:
Find up € H} (L, Q") such that

B (ug,v) = F (v) — B (u1,v) Vv e Hp,o (L. Q7). (2.152)

2.9.2.6 Exterior Neumann Problem (ENP)

Let L again be the general differential operator from (2.98) with ¢ > 0 or the
Laplace or Helmholtz operator and let H' (L, Q%1), H} (L, Q") and H} (L,Q7),
H%,o (L,22%) be as in Remark 2.9.3.

In this case we multiply the differential equation in the strong formulation (2.135)
by test functions from CZ (Q+) and then apply Green’s second formula from

Theorem 2.7.7. We then have
B (u,v) =f _deX—i—/ gnVdsy,
Qt r

where yju has already been replaced by the Neumann data gn. The sesquilinear
form B can be extended to H! (L, Q+) x H} (L, S2+). The variational problem

then becomes: For a given F € (H} (L, Q"’))/ findu e H! (L, Q+) such that

B u,v) = F (v) Vve Hy (L.QF). (2.153)
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Combined with sufficiently smooth data g and an f [see (2.135)] which is known,
the functional F is given by

F @) :=/ dex+/gNVdsx. (2.154)
Qt r

2.9.2.7 Exterior Mixed Boundary Value Problem (EMP)

Let L again be the general differential operator from (2.98) with ¢ > 0 or the
Laplace or Helmholtz operator and let H! (L, Q"), H; (L, Q%) and Hy (L, Q1),
H}’O (L, Q"’) be as in Remark 2.9.3.

Let I be decomposed into I'p and 'y as in (2.136). The relevant function space
is given by

Hp (L, Q%):={ue H' (L,Q"):u=0o0nTp in the sense of traces} .

The variational formulation of the exterior mixed boundary value problem then
/
reads: For F € (H}D (L,Q+)> findu € H? (L,Q"’) with u = gp on I'p
such that
B u,v) = F (v) Vve Hrp (L.QF). (2.155)

For the strong formulation the functional F is given by
F ) := / fydx + / gnvdsx  Yve Hjp(L.Q%). (2.156)
ot Ty ’

By means of a trace extension ug € H! (L, Q"’) that satisfies uo = gp on I'p, this
problem can again be transformed into a homogeneous boundary value problem,
although we will not go into detail here.

2.9.2.8 Transmission Problem (TP)

For s € {—,+} the differential operator L® refers to the domain Q° (see
Sect.2.9.1.7). Let L™ be the general differential operator from (2.98) with ¢™ > 0
or the Laplace or Helmholtz operator and let H' (L*,Q%), H} (LT, Q") and
H{} (L+, S2+), H%,o (L+, Q"’) be as in Remark 2.9.3.

In order to derive the variational formulation we multiply (2.137) by functions
veCy® (]Rd) and integrate over Q~ U Q. The conditions for u and v allow us to
apply Green’s formula (2.110)

B— (u,v) + B+ (u,v) = (V) p2(ra) — (@N> VoY) L2(r) - (2.157)
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The sesquilinear form is well defined for functions u = (u_, u+), v = (v_, v+) IS
H'(Q7) x H! (L, Q"’) that satisfy [v] = 0. We define the closed subspace W C
H'(Q7) x H} (L, §2+) and the associated test space W as

(uut)y e HY(Q7)x H' (L, Q%) : [u]
(vovt) e HE (Q7) x H} (L. Q%) : V]

<
I
——
< S
I

0.
0 (2.158)

).

1/2
The norm on W is given by ||uly, 1= {||u_||%{1(9_) + Hu+ Hi{l (L Q+)} and the
norm ||u||;5 is defined analogously.
Then the variational formulation of the transmission problem (2.137) reads: Let
F € W and gp € HY2(I') be given. Find u € H' (Q7) x H' (L, Q") with
[4] = gp such that

B_(u.v)+ By u,v)=F(v)  VveW. (2.159)

For the strong formulation (2.137) the functional F is defined by the right-hand side
of (2.157) for sufficiently smooth f and g.

2.9.3 Egquivalence of Strong and Weak Formulation

The variational formulation was derived from the strong formulation by multiplying
it by test functions, integrating and then integrating by parts.

In this section we will discuss whether the solution of the variational problem is
also a solution of the strong formulation of the boundary value problem. To do this
we have to integrate back by parts in the variational formulation. However, the con-
ditions in Theorem 2.7.7 require that u € H ]1 (2). In general, a weak solution does
not satisfy these conditions. If the weak solution is to solve the strong formulation
an additional regularity condition u € H ]1 (£2) has to be fulfilled.

2.9.3.1 Interior Problems

Let u be the solution of one of the interior problems: IDP (2.140) with right-hand
side (2.139), INP (2.142) with right-hand side (2.143) or IMP (2.144) with right-
hand side (2.145). In the derivation we make the following assumption.

Assumption 2.9.4. For the variational problem we have:

(a) Q7 is a Lipschitz domain.

(b) The weak solution satisfiesu € H 11‘ (27) and in the case of a Neumann problem
yiu € L% (D).

(c) The functional on the right-hand side is defined by (2.139), (2.143) or (2.145)
with f € L?> (Q7) and gy € L? ().
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The condition u € H 11‘ (27) allows us to apply Theorem 2.7.7, which in turn
allows us to undo the integration by parts. Therefore the weak solution u satisfies

(Lu— fiv)p2ig-y =0 YveV,
L2 (Q7)

with
H{ (7) for (2.140),
V=41 H' (Q7) for (2.142),
Hé (R27) for (2.144).

Assumptions 2.9.4.a and b imply that Lu— f € L? (7). Since HO1 (27) is densely
embedded into L? (27) (see Proposition 2.5.2) the embedding V' C L? (Q7) is also
dense. Therefore there exists a sequence (v,), C V C L? (™) withv, — Lu— f
in L2 (™) that satisfies

. _ : _ 2
0= Jim (Lu~foon) ey = (Lu=f Jim ) | o =L~ flfag-

With this we have shown that if the weak solution u satisfies the additional con-
ditions u € H} (Q7) and f € L?(Q7) it also satisfies the differential equation
Lu = f almost everywhere.

For the IDP and the IMP the Dirichlet boundary conditions you = gp on I'p are
required explicitly. Here we will only consider the INP, the proof for the IMP can
be done in the same way.

From Lu = f in L? (Q7), (2.142) and Theorem 2.7.7 we have

0=B®uv)—(fiv)r2@@-) — (&N Y0V) L2(1)
= (Lu— fiv)r2(-) + (V14— gn,YoV) L2(1)
= (Y14 — &N, YoV) L2(1)

forall v € H' (7). Lemma 2.8.4 implies that the image of H! (27) under Yy is
dense in H'/2 (T) and therefore is also dense in L2 (T"). It follows that

(yiu—gn. w2 =0  VYwe L*(T).

With Assumptions 2.9.4(b) and 2.9.4.c we have yju = gy in L? (T).

2.9.3.2 Exterior Problems

In principle, the argument for exterior problems is the same as for interior problems.
However, Assumption 2.9.4 does not guarantee that the conditions of Theorem 2.7.7
are satisfied. In general, neither the weak solution nor the test function v €
H } (L, Q+) has compact support. We will however show that under suitable condi-
tions Green’s second formula remains valid for functions that do not have compact
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support. For this we consider the following abstract situation, which has been chosen
to fit Remark 2.9.3.

Assumption 2.9.5. V = C2 (@) " and Vp 1= C2 (@) "7 are the

comp comp
closures of the sets of smooth functions with compact support with respect to the

norms |||y and ||-||y,. respectively, so that:

(a) V, Vr are complete and satisfy V, Vr C chl)c (Q+)
(b) B :V x Vr — C is continuous.

Theorem 2.9.6. Let Assumption 2.9.5 hold for the spaces V,Vr. Then Green’s
second formula is applicable for allu € V N Hi (Q"’) andv € Vr.

Proof. (a) Since Vy C H,}_ (Q7) there exists a continuous trace operator yo : V7 :
H'2(T) (see Theorem 2.6.8).

(b) Forallu € V. N H} (Q%) and v € CZ5, (@) we have, with Theorem 2.7.7,
Green’s second formula

(Lu,v)Lz(Q+) — B (u,v) = (yau, yov) L2(r) -

The mapping (Lu,);2(q) : Vr — C is continuous, since we assume that Lu

has compact support and that V7 C H,!. (7). Due to Assumption 2.9.5.b, the
sesquilinear form B : V x Vr — C is continuous. If, for an arbitrary v € V7,
we choose a Cauchy sequence (vn), C Cgy,, that converges towards v with
respect to the Vr-norm we have

nlgr;o{(Lu, V)2 (at) — B (@ vn)} = (Luv) 2y~ Bwv).  (2.160)

On the other hand, according to Theorem 2.7.7, y;u defines a continuous
functional on H /2 (T"). Therefore because of (a) we have

Jm (v, yova) L2 ry = (Vi Yov) L2(ry -

which with (2.160) proves the statement. O

In order to apply this result to the exterior problem we use the function spaces
that were defined in Remark 2.9.3. We set V := H' (L,Q™), Vr := H} (L, Q™)
and check the conditions from Assumption 2.9.5.

Continuity:

In Lemma 2.10.1 and Theorem 2.10.10 we will show the continuity of the sesquilin-
ear form B on H' (%) and on H! (—A, Q™). The continuity for the Helmholtz
problem is investigated in Corollary 2.10.3.
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Embedding:

The embedding from Assumption 2.9.5.a follows for all considered differential
operators, as the weight functions only influence the behavior of the functions
f € W atinfinity.

Therefore Assumption 2.9.5 is also satisfied and Green’s second formula is appli-
cable foru € H} () N H' (L,Q) and v € H} (L,). The way in which we
treated the interior problems, in this case deriving the strong formulation from the
weak formulation, can be repeated identically for the exterior problems.

Decay Condition:

In the following chapters, the solutions of the boundary value problems that have
been discussed above will be represented by means of a surface integral, from which
the decay conditions for the Laplace operator, Helmholtz operator and the general
elliptic operator with ¢ > 0 can be deduced immediately [see (3.22) and (3.23)].
The Sommerfeld radiation conditions for the solution of the Helmholtz problem are
discussed with the help of the integral representation in Exercise 3.1.15.

2.10 Existence and Uniqueness

In the previous section we formulated interior and exterior elliptic boundary value
problems as variational problems. We will now give the most important results on
existence and uniqueness. Since the focus of this book is on integral equations
for elliptic boundary value problems, we will not elaborate the analysis of elliptic
differential equations. Instead we will refer to the appropriate textbooks. First we
will prove the continuity and coercivity of the sesquilinear form B for the interior
problem.

Lemma 2.10.1. Let 2 € {Q_, Q+}. The sesquilinear form B (-,-) as in (2.102) is
continuous and there exist positive constants Cy, Cy such that

Re B (u,u) > C; ”'4”%11(9) -G ||”||i2(g) Vue H' (Q).

Therefore B is coercive on H' (Q) for @ = Q™.
Proof. Let amax (amin) be the largest (smallest) eigenvalue of the matrix A. Then,

with the notation (2.79), we have for all u,v € H! (Q)

|B (u,v)| < /Q (@max [Vl VY] + 2B [Vul| [v] + [e] |u] [v]) dx

=< amax Ul g1(@) WE1(@) T 2l ul 1) V2@
+ lel lull L2 @) VL2 (@)
< 3max {amax. 2 [[b|, [c]} lull g1 @) VI F1 (@)
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For the proof of the coercivity we use for arbitrary §, & > 0

2 2 — 2 2
Re B (u,u) = i ul371 gy — D (8 ul3y1 gy + 67" 3209 ) + € 1l 2(q
2 2 — 2
> (amin — 8 ||b]) |”|H1(Q) +¢ ”u”LZ(Q) + (C —|Ib]| & '— 8) ||”||L2(Q) .

We now choose 0 < & < dmin and set § := (amin — &)/ ||b|| if ||b]] # O and
8 := +o00 otherwise. We then have

Re B (u,u) = & ||u][ 31 ) + (¢ — b 67" —&) [ull72q) - (2.161)

If Q = Q the compact embedding L? () < H'! () (see Theorem 2.5.5)
implies the coercivity. O

In Corollary 2.10.2 the quotient space H'! (Q27) /K appears. Its equivalence
classes consist of functions in H! () that only differ by a constant. A norm on
this space is given by

—yg = inf ||u— . 2.162
”u”Hl(Q )/K ClgR [|u C||H1(sz ) ( )

Corollary 2.10.2. (a) The result from Lemma 2.10.1 also holds for every subspace
of H' (7).

(b) The sesquilinear form is elliptic on H' (27) if we have apinc > ||b||2

(c) Forb = 0andc = 0, the sesquilinear form B_ is elliptic on H} (7).

(d) Forb = 0and c = 0, the sesquilinear form B_ is elliptic on H' (27) /K.

(e) The inequality (2.161) also holds for the exterior problem, i.e., Q@ = QT and
B = B.. Therefore, for aminc > ||b||2 the sesquilinear form By is elliptic on
H! (Q+) and, consequently, on every subspace.

Proof. Statements (a), (b) and (e) follow directly from the proof of the previous
lemma.

(c): Here we use Theorem 2.5.7 and obtain
Re B (i, 1) = amin [ul 71—y = C llul 31 o Vue Hl (Q7).
Statement (d) follows from the second Poincaré inequality (Corollary 2.5.10)
Il 31 @yyx < C lulp @y < C/amnRe B (w,u)  Yue H' (Q7) /K.
O

Corollary 2.10.3. The sesquilinear form of the exterior Helmholtz problem is con-
tinuous.

Proof. If we use the explicit representation of the sesquilinear form of the Helmholtz
equation and apply the Cauchy—Schwarz inequality, we obtain for all u € H!
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(L, Q"’) andv € Hj (L, §2+) the continuity

B (u,v) = [sz+ ((Vu,V\_)) —k2u17) dx < |u|H1(Q+) |v|H1(Q+)

2 Jur|

1/2’

L2(a+) H P e

< (1+k?) lull gy z.o+) IVl aL(z.0+) -

O

By combining Lemma 2.10.1 and Corollary 2.10.2 with the results from
Sect. 2.1.6 one obtains the existence and uniqueness of the solution for the boundary
value problems from Sect. 2.9.2.

2.10.1 Interior Problems

We first prove the results on existence and uniqueness for interior problems.

2.10.1.1 Interior Dirichlet Problem

The following theorem will demonstrate that the Fredholm alternative always holds
for the Dirichlet interior problem. Furthermore, if the coefficients of the differential
operator satisfy suitable conditions, the Lax—Milgram lemma guarantees the exis-
tence and uniqueness of the solution.

Theorem 2.10.4. We consider the IDP [see (2.140)] and assume that the func-
tional F is defined as in (2.139) and that we have gp € H'? (T') for the boundary
data:

1. The Fredholm alternative is applicable: Either, for every right-hand side F €
HO1 (Q7) and boundary data gp € H'/? (T), the problem (2.140) has a unique
solution u € HO1 (27) that depends continuously on the right-hand side, i.e.,

lellzr1 @y = € (IF g amy + gD a2 )

or zero is an eigenvalue of the operator associated with B that corresponds to a
finite-dimensional eigenspace.

2. The condition aminc > ||b||2 implies that the first case will always apply in the
above-mentioned alternative.

3. Statement (2) remains true if the condition amnc > ||b||* is replaced by ¢ =
[Ib]| = 0.
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Proof. For 1: We use the approach u = uo + u; with the trace extension u; :=
Z_gp. The right-hand side in (2.141) defines a continuous functional on HO1 (2):

|F (v) = B (u1,v)| < (IFll g-1(0-) + C1 llu1ll g1 @) Wl a1 @
< (IFllg-1@-y + C2 gl gir2my) Wl @- -

so that the Fredholm alternative (see Theorem 2.1.60) is applicable for (2.141). The
assertion for the problem (2.140) then follows from [lul| 1 @-) < lluoll g1 (- +

Cligplmiry-
For 2,3: The proof is done in the same way as in the first part. Here we combine

Corollary 2.10.2.(b),(c) with Lemma 2.1.51. O

2.10.1.2 Interior Neumann Problem

In the following theorem we will formulate results on existence and uniqueness for
the interior Neumann problem.

Theorem 2.10.5. We consider the INP (2.142), (2.143) and assume that f €
(H' (@), gn € HV/2():

1. The Fredholm alternative is applicable: Either, for every right-hand side F €
(H1 (Q_))/ the problem (2.142) has a unique solution u € H'(Q7) that
depends continuously on the right-hand side [see (2.89)], i.e.,

lull g1 @y < C I1F g1y =C (||f||(H1(Q—))’ + ||gN||H—1/2(F))

or zero is an eigenvalue of the operator associated with B that corresponds to a
finite-dimensional eigenspace.

2. The condition apinc > ||b||2 implies that the first case will always apply in the
above-mentioned alternative.

3. Let ¢ = ||b|| = 0. Then there exists a solutionu € H' (Q7) if and only if f and
g satisfy the relation

(i) 2@ + (gn: )2y = 0. (2.163)

The solution is unique up to a constant function. Therefore, if we restrict the
solution space to H' (Q7) /K, there exists, for all f € (H1 (Q_)), and gN €
H~'2(T) that satisfy (2.163), a unique solution in H' (™) /K that depends
continuously on the data.

Proof. The proofs of (1) and (2) are similar to the proof of Theorem 2.10.4. The
proof of (3) can be found in, e.g., [162, Theorem 8.19]. O
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2.10.1.3 Interior Mixed Boundary Value Problem

We now move on to existence and uniqueness results for the interior mixed boundary
value problem [see (2.9.2.3)].

Theorem 2.10.6. The results from Theorem 2.10.4 also hold for the interior mixed

boundary value problem. Here T has to be replaced by I'p and HO1 (Q7) by
H} (7).

Proof. The proof of this statement is analogous to the proof of Theorem 2.10.4. To
prove the third statement we use Corollary 2.5.8. O

2.10.2 Exterior Problems

Results on existence and uniqueness for exterior problems require the use of the
weighted Sobolev spaces H ! (L, §2+) that were introduced in the previous section
(see Remark 2.9.3).

2.10.2.1 General Elliptic Operator with a,c > ||b|?

If we combine Corollary 2.10.2.e with the Lax—Milgram lemma we get existence
and uniqueness for the exterior boundary value problems under the condition that
dmin¢ > ||b||>. Note that in this case we have H' (L, QF) = H} (L, Q%) which is

w9

why we can omit the “~” notation.
Theorem 2.10.7. Let apinc > ||b]|>.

(a) EDP (2.150). Forall F € H™! (Q+) and gp € H'Y? (T) there exists a unique
solutionu € H' (Q+) that depends continuously on the data, i.e.,

el 1 (@) < € (1F g1 o) + lgn ) -

(b) ENP (2.153). For all F € (H1 (Q+))/ there exists a unique solution u €
H! (Q+) that depends continuously on the data, i.e.,

||“||H1(sz+) <C ||F||(H1(Q+))/'

(c) EMP (2.155). For all F € ( é ( ))/ and gp € HY?(Tp) there exists a
unique solution u € H1 (Q+) that depends continuously on the data

el zrsaey = € (IF sy @y + N8nlmras) )
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(d) TP (2.159). Let W be as in (2.158). For all F € W’ and gp € HY/?(T) there
exists a unique solution u € W that depends continuously on the data

lellw < C (IFllw: + llgnllg/2qry) -

Proof. The proofs for the interior problem can be directly transferred to this partic-
ular case. O

2.10.2.2 Laplace Operator

The proof of existence and uniqueness results for the Laplace operator is more elab-
orate than for the differential operator from Sect. 2.10.2.1 because of the use of the
weighted Sobolev spaces.

We begin with a few auxiliary results on the function spaces H' (—A, Q") and
HO1 (—A, §2+) (see [80, Chap. XI, Part B]). For the Laplace operator the inner prod-
uct and the norm on H'! (—A, Q"’) and H|/ (—A, Q"’) are defined by (2.148). We
will first show that the norms [see (2.148), (2.79)] ||'||H1(—A,sz+) and |'|H1(sz+) are

equivalent on H, (—A, §2+) for exterior problems. For the proof we again denote
the ball with radius a > 0 around the origin by B, := {x € R? : ||x|| < a} and the

exterior complement of B, by B} := R4\ B,.
Proposition 2.10.8. For a > 0, the norms |-|H1<B+) and ”'”Hl(—A B+) are
equivalent on Hy (—A, B}Y).

Proof. As C§° (B;7) is dense in Hy (—A, B}) it suffices to show the equivalence
for smooth functions.

(i) The inequality |u| is obvious.

Hl(Bj) E ”u”Hl(—A,Bj)
(i) We will now show that ||u||H](_A B+) <C |u|H1(B+). Obviously, we only

need to show that

2
/ &)'degcwl .
B 1+ ||| 1 (8F)

We introduce spherical coordinates x = r{ with £ = x/ ||x|| € S;, where S,
denotes the unit sphere in R3. We then have

2 00 2
/ |M(X)| de S/ [ |L£ (ré‘)l eré-dr.
B 1+ x| a Js; 1471

For functions f (r) that vanish for sufficiently large r and satisfy f (a) = 0,
we have, with the help of integration by parts:
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/Oo \f (P dr = —/OOZrRe (f r) 8,7(1’)) dr (2.164)

00 1/2 ) 1/2
52(/ If(r)lzdr) (/ |8rf(r)|2r2dr) ,

[oo |f () dr < 4[00 19, f (r)|? r2dr.

Since u has compact support, we can choose f (r) = u (r¢) in (2.164). We
obtain the required inequality by integrating over S:

[sz /aoo |LI (fr)frzdrdf = [Sz [aoo u(ro)> drdg

o 2.2
54/SZL 0 (rO)P r2drdg

2
:4/BJ <i Vu(x)>

, dx < 4|ul? .
IxI H' (55)
Note that the equivalence constant is independent of a.

i.e.,

B

Remark 2.10.9. The spaces HO1 (—A, §2+) and H! (—A, §2+) are complete by
definition. They become Hilbert spaces once we define the inner product from
(2.148) on them.

From Proposition 2.10.8 we directly have an inequality of Poincaré type for
H'(-A, Q7).

Theorem 2.10.10. |-| ;1 (@+) defines a norm on H! (—A, Q+) and HO1 (—A, Q+)
that is equivalent to the ||-|| g1 (~a.Q+) norm.

Proof. Since HO1 (—A, §2+) Cc H! (—A, Q"’) we only need to prove the statement
for H1 (—A, S2+).

(i) We obviously have |u|H1(Q+) < ||”||H1(—A,sz+)-
(i) We prove ||u||H1(_A’Q+) < C |u|H1(Q+) indirectly. We assume that there
exists a sequence (i), ey in H' (—A, Q) such that

unlgiery <0 lunllgicaery =1 (2.165)

For sufficiently large a > 0 we have 2 C B,. We choose a cut-off function
¢,y € C® (Q7F) (see Fig.2.2) with
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[ [, o | \>6

\ ! I~ J2a

Fig. 2.2 Cutoff functions ¢ and v for the proof of Theorem 2.10.10

é. 9 >0, p+v=1inQ", ¢(x)=0 forall |x|>2a and
Y (x) =0 forall x| <a.

We obviously have u, = ¢u, + Yu,. By differentiating the products v and
¢vforve H! (—A, Q+) we obtain

W (o) = Mar () + ¢ Wle2(aanaty (2.166)

|¢V|H1(Q+) = |V|H1(B2gns2+) +C ||V||L2(Bzar1$2+) .

For every a > 0, H' (B2q N Q%) is compactly embedded in L? (B2, N Q)
(see Theorem 2.5.5). Therefore there exists a subsequence (un j)j oy (see
Theorem 2.5.6) that satisfies

un, >u  inL? (B, NQY).

J

From (2.165) and (2.166), (Yu, ;) and (¢u, ) are Cauchy sequences in H'
(B;F)and H' (Q). Since Yu,, € Hy (B;), Proposition 2.10.8 is applicable
and implies convergence in the H' (—A, B )-norm as well. Since ¢uy ; has

compact support the norms in H' (B}) and H' (—A, B}) are equivalent and
hence
Pun; — wi with respect to ||'||H1(—A,S2+) ,

Vi, > W TESPREL 0 g )
a

Therefore u, , = (¢ + V) upn; convergestosomew € H' (—A, Q7). Assump-
tion (2.165) implies that Vw = 0 and therefore that w is constant. Finally, from
we H! (—A, Q"’) we have w = 0, which is a contradiction to (2.165). ]

Exterior Dirichlet Problem
We now come to the theorem on existence and uniqueness for the exterior Dirichlet
problem.

Theorem 2.10.11. We consider the (EDP) [see (2.150)]. Let F be defined as in
(2.151). Then, for every f € (HO1 (—A, Q+))/ and gp € H'Y?(T), the exterior
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Dirichlet problem has a unique solution u & HO1 (—A, Q"’) that satisfies the
inequality

lull 1 (-a,0+) = WF gy (—aeryy +ClIgDIHI20) -

Proof. We choose a > 0 with 2 C B,. By using the trace extension operator (see
Theorem 2.6.11) Z, := Zp, : H'/?(T') — H{ (B,) the Dirichlet data gp can be
extended:

IZagpllgi(—a.0+) = CillZagplH1(8,) = C2llgD I H172(r). (2.167)

We use the approach u = ug + Z,gp in (2.150) and thus obtain an equation of the
form (2.152) with u; = Z,gp forugy € HO1 (—A, Q+).

As in the proof of Theorem 2.10.4, part 1, it can be shown that the right-
hand side in (2.152) defines a continuous linear functional on Hj (—A, Q7).
Theorem 2.10.10 implies that the sesquilinear form B is elliptic on H' (—A, Q)
(and therefore also on HO1 (—A, Q+)). Thus

B(v,v) = /;z+ IVv|*dx > C ||V||21(_A,Q+) Vve H' (-A,QY).
(2.168)
The continuity of B follows from Theorem 2.10.10. The Lax-Milgram
Lemma 2.1.51 becomes applicable and as a consequence the problem (2.152) has a
unique solution ug € Hy (—A, QT) with
ol st (<a.+) < IE sy (_a)y + € 1 Zagnllm s,y
< ||F||(H(; (-aat)y TCE) gl -

Exterior Neumann Problem

We now consider the exterior Neumann problem for the Laplace operator.

Theorem 2.10.12. For every F € (Hl (—A, Q+))/ there exists a unique solu-
tionu € H! (—A, Q"’) of the exterior Neumann problem (2.153) that depends
continuously on F:

”M”Hl(_A’Q-F) <C ”F”(Hl(_A’Q'F))/'

Proof. We combine Corollary 2.10.2.(e) and (2.168) with the Lax—Milgram
lemma 2.1.51 and thus obtain the statement. O
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Exterior Mixed Boundary Value Problem

Results concerning existence and uniqueness can be found for the EMP analogously
[see (2.155)].

Theorem 2.10.13. The results from Theorem 2.10.11 hold for the exterior mixed
boundary value problem. Here I has to be replaced by I'p and HO1 (L, Q+) by
HY (L.Q%).

Transmission Problem

We finally turn our attention to the transmission problem (2.157).

Theorem 2.10.14. We consider the TP (2.159) with W as in (2.158). For every
F € W' and gp € HY2(T) there exists a unique solution u € H'(Q7) x
H! (—A, Q+) of the transmission problem (2.159). It depends continuously on F
and gp:

lully < C IF s + 80l 2y -

Proof. We use the approach u = ug + u; with u1|g+ = 0 and uy|g- := —Z_gp.
Then we have u; € H' (Q7) x H! (—A,Q"’) and [u;] = gp. Then uy is the
solution of the problem: Find ug € W such that

Bgo-yuq+ (uo,v) := B— (uo,v) + By (uo,v) = F (v) — B— (u1,v) YveW.
(2.169)
The continuity of Bg-_o+ and the right-hand side in (2.169) follow from
Lemma 2.10.1.
For the Lax—Milgram lemma we still need to show the ellipticity of Bo— o+
For an arbitrary function v € W we set v~ := v|g— and v := v|g+. Since
up € W C H' (Q7)x H' (—A, Q), the ellipticity of By on H' (—A, Q™) gives
us [see (2.168)]
B (vFovt) = Co v i Cagty (2.170)

For v~ we set g = yg v~ and w~ := Z_g with the trace extension Z_ :
H'Y2(T) — H'(Q") from Theorem 2.6.11. Then we have v~ —w™ € HJ (Q7)
and due to the Friedrichs inequality (see Theorem 2.5.7)

1 @my < 210" =W amy + 2197 W1 o)
<2C I —w Higs T 2IW 131 e
<4C IV gy + @ +40) 1w I3 am
=CiB_(v,v)+C ||W_||§11(sr) .
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The continuity of the trace extension and the trace operator as well as the condition
[v] = 0 give us

W a1 @y = 1Z2-gllar@-) = C3ligllaizay = Csllvo v | gz
_ +. + +
=Cs |y v HHI/Z(F) < Calv ||H1(—A,Q+) :
From this we obtain
_ _ 2
IV Iy < C1B- 7)) + CCZ v 1 a0+
If we combine this result with (2.170) we obtain the assertion
_ 2 _
Wiy = 11y + [V o (ca o4y = CLB- 0707
+ (14 CCF) Cy ' By (vivT). (2.171)

O

In the case of the general elliptic operator L from (2.98), especially when
L # —A and apmnc < ||b]|%, proving the results on existence and uniqueness
becomes far more complicated.

2.10.2.3 Helmholtz Equation
The Helmholtz equation in the interior space
Lyu=—Au—k?>u= f in Q (2.172)

with Dirichlet or Neumann boundary conditions you = gp € H 12(T) or yru=
gy € H7Y2(T) and with the sesquilinear form B_(u,v) = [o— ((Vu, Vv)—
kzuv) dx has, according to Theorem 2.10.4.1 and Theorem 2.10.5.1, a unique
solution if and only if k2 is not an eigenvalue of the IDP or INP.

For the Helmholtz equation in the exterior space

Lyu:=—Au—k*’v=0 inQ" (2.173)

we are looking for solutions that satisfy the Sommerfeld radiation conditions
(2.133).

Theorem 2.10.15. The variational problem (2.150) that is associated with the EDP
from (2.173), has a unique solution u € H'(Lg, Q") for every gp € HY2(I).
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For a proof we refer to, e.g., [154,170]. Note that the additional term (d,u —i ku,
0v — ikv)2 in the sesquilinear form (2.149) represents the analogy to the Som-
merfeld radiation condition. We have a corresponding result for the Neumann

problem:

Theorem 2.10.16. The variational problem (2.153) that is associated with the ENP
from (2.172) has a unique solution in H'(Ly, Q%) for every gy € H™V/2(T).



Chapter 3
Elliptic Boundary Integral Equations

Homogeneous, linear elliptic boundary value problems with constant coefficients
can be transformed into boundary integral equations by using the integral equation
method. In this chapter we will introduce the relevant boundary integral operators
and we will derive the most important mapping properties and representations. We
will also present the boundary integral equations for the boundary value problems
from the previous chapter. Finally, we will prove the appropriate results on existence
and uniqueness for these boundary integral equations.

3.1 Boundary Integral Operators

We consider the differential operator L from (2.98)
Lu = —div (A gradu) + 2 (b, gradu) + cu. 3.1
Our goal is to solve the homogeneous differential equation
Lu=0 in Q (3.2)

for this operator with appropriate boundary conditions. Solutions of these differen-
tial equations can be formulated with the help of potentials that are closely linked to
the fundamental solution of the operator L, which in turn can be formulated explic-
itly. In general, we assume that the coefficients of L satisfy A € R?*¢ positive
definite, b € R? and ¢ € R. With the help of the matrix A we can define an inner
product and a norm on R¢

(xy)y =xTA"'y  and [x|, = (x,x)}/2.

We set  := ¢ + |[b]|3 and A = /& for @ > 0 and A = —i /|| otherwise. The
fundamental solution G (x — y) then has the following form

S.A. Sauter and C. Schwab, Boundary Element Methods, Springer Series 101
in Computational Mathematics 39, DOI 10.1007/978-3-540-68093-2_3,
© Springer-Verlag Berlin Heidelberg 2011
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PILEIN 1
rnJioA log N ford =2and A =0,
G (z) = e®oa oy
(z) = 4\/ﬁzHO (iA]z]|,) ford =2and A # 0, (3.3)
1 e{bzha—Allzll s
oY=y TN ford = 3.
The function G is singular for z = 0 and analytic for z # 0. By choosing A = 1,
b = 0 and ¢ = 0 we obtain the Laplace operator L = —A and the fundamental

solution to the Laplace operator.

With the help of the fundamental solution we can introduce the single layer
and double layer potentials for v € L' (T"). We recall the notation yo for the
trace operator (see Theorem 2.6.8), y; for the conormal derivative (see (2.103) or
Definition 2.7.6) and ¥7 for the modified conormal derivative (see (2.107) or Defini-
tion 2.7.6). In order to explicitly state whether the trace is applied from the interior

or exterior domain, we use the indices “—" for the interior and “+” for the exterior
domain.
Single Layer Potential:
(Sv) (x) := / G(x—y)v(y)dsy, xeRI\T (3.4)
r

Double Layer Potential:

OV = [ 6 x-yr(ds,  xeRAL (3.5)

r

where the subscript y in 1y indicates that the modified conormal derivative 7 is
applied with respect to the y-variable. Since the fundamental solution G (x —y) is
regular for x # y, the single and double layer potentials are both well defined.

Theorem 3.1.1. Letv € L' (I").
(a) We have

(LSv)(x) = (LDv) (x) =0  forallx € RY\T.

(b) The functions Sv and Dv are infinitely differentiable in Rd\F.

Proof. For (a): We set ks (x,y) := G (x—y) and kp (X,y) := Y1y,G (x—y). Let
Xo € R3\TI'. Then there exists a compact neighborhood Uy of x that is entirely
contained in 2 € {Q_, Q+} and therefore has a positive distance to I'. The restric-
tions kg, kp : Uy x I' — C are then bounded and are differentiable for almost
every y € ' on Up. For all x € Uy, kg and kp are integrable over I". The
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theorem on dominated convergence then implies that differentiation and integra-
tion may be interchanged. Ly denotes the application of L with respect to the x
variable. This gives us the assertion from LyG (x —y) = Ly (y1,G (x—y)) =
YiyLxG (x—y) = 0.

For (b): The statement then follows from repeated application of the arguments
given in (a) by means of induction. O

In order to solve problem (3.2) we can therefore consider the ansatz Sv or Dv.
As aresult of Theorem 3.1.1, for every boundary density v, this ansatz satisfies the
homogeneous differential equation (3.2). Therefore the problem is reduced to the
question of whether the boundary density v can be determined in such a way that
the boundary traces of these potentials satisfy the boundary conditions.

Formally, the boundary integral operators V, K, K’, W can be defined by means
of the introduced conormal operators yy, y1+ , vy . Foro € {—, 4} we set

Vv = yoSv, Ko :=y5 Dy,
(3.6)

Ky = y7Sy. Wui=—y; (Du).

The index + or — indicates that the trace operators y¢ (w) and y; (w) are applied
to the restrictions w|q+ and w|q- respectively. We will show (see Theorem 3.3.1)
that we have y(;" Sv = yg Svand yl‘"Du = y1 Du, which is why we have already
omitted the indices = in the definition of V' and W.

3.1.1 Newton Potential

Before we turn our attention to the mapping properties of the above-mentioned
potentials and boundary integral operators, we will consider the converse problem.
If the Dirichlet and Neumann data of a function u that satisfies Lu = f are known,
it can be formulated in terms of the boundary data and f explicitly. The associated
formula is called Green’s representation formula. The derivation of this formula
uses the mapping properties of the Newton potential, which in turn are proven by
means of a Fourier analysis. Here we will restrict ourselves to an overview of the
required properties, and for proofs we refer to [133,184] and [162, Theorem 6.1].
For a given f € L2, (R?) we consider the functions u € H} (R?\T') [see
(2.113)] with
Liu=f  inRI\T (3.7)

[see (2.114)]. The Newton potential

NF (x) = /R Gx—y) f®dy VxeRd (3.8)

will play a significant role in the representation of the solutions of this equa-
tion. We will first need a few mapping properties of the Newton potential. For
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functions f € C§° (Rd), N f is defined as an improper integral: N : C§®° (Rd) —
(O (]Rd). We use Fubini’s theorem to obtain a representation of the dual operator.
The extension of the inner product (-, -); > (rd) 1O L? (Rd) x L2 (Rd) is again

loc comp

denoted by (-, ')LZ(Rd)- For f,g € Cg° (Rd) we then have
Wroeen = [ ([, 66-nrmiy)zwax

=/ f(y)(/ 6(x—y)g<y)dy)dx,
Rd ]Rd

and thus we obtain the representation

Wew=[ Tx-pe@ax  vyerd, (3.9)

The mapping property N : C§° (R?) — C*° (R?) of the dual Newton potential
can be shown in the same way. The domain of the Newton potential can be extended
to functionals f € (C° (R?))" by means of the dual mapping. The functional

Nf € (€ (RY)) is characterized by

W, V)LZ(Rd) = (f,/\f/v)Lz(Rd) Vv e Cg° (]Rd).
The Newton potential can also be defined for functions in Sobolev spaces (see [216,

Sect. 6.1]).

Theorem 3.1.2. For the Newton potential, the mapping

Nt iy (RY) > Hi2? (RY)

comp

is continuous for all s € R.

Remark 3.1.3. Problems in acoustics and electromagnetism can often be described
by the Helmholtz equation with the operator

Liu=—Au — k?u, k € R.

The associated fundamental solution [see (3.3)] for d = 3 is given by
eliklzl
Gk (2) = ——.
4 |z

and the associated Newton potential is denoted by Ny. Then Ny is the Newton
potential (Coulomb potential) for the Laplace operator. The expansion
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ik
G (@) = G} @) + G} @) + G @) = —— + — + 0" |z])

4z |z

shows that the kernel Gy — Gy is continuous at ||z|| = 0 and has bounded derivatives
that are discontinuous in z = 0. With the help of the calculus of pseudo-differential
operators we obtain the mapping property

Ne = No: HYo (RP) — HEFH(R?) Vs eR
by reasoning as follows. From [137, Definition 7.1.1 and (7.1.2)], we conclude that
G,ICII has a pseudohomogeneous expansion of degree 1 so that, according to [137,
Theorem 7.1.1], the associated volume potential ./\/',?Iu = Jg3 G,ICII C—y)u(y)dy
belongs to [,C_14 (R3), i.e., to the classical symbol class as defined, e.g., in [137,
Definition 6.1.6]. From [137, Definition 6.1.12], we conclude that N;H
Heonp (R3) — HT* (R3) is continuous for all s € R. For the volume poten-
tial associated to G,Ig (z) this mapping property follows trivially because the kernel
function is constant.

The formal adjoint operator L* : C® (R?) — C > (R?) from (2.105) satisfies
(Lu, V)LZ(Rd) = (u, L*V)Lz(Rd) Yu e Cy° (Rd) Yve C® (]Rd) .
Thus the domain of L can be extended to (C* (R¥))" as well as (C° (R?))":

(LS g)LZ(]Rd) = (f L*g)Lz(Rd) Vfe (C°° (]Rd))/ VgeC® (]Rd),
(Lf,g)Lz(Rd) = (f, L*g)Lz(Rd) Vfe (C(?o (Rd))/ Vg e C(?o (Rd) :

The following theorem shows that the Newton potential constitutes a right and
left inverse of the operator L.

Theorem 3.1.4. For all functionals u € (C°° (]Rd))/ we have
LNu=u=NLu in (Cé’o (]Rd»/.

The explicit representations (3.4) and (3.5) of the operators S and D are only
suited to locally integrable functions v € L!(T"). The domain of the single and
double layer potential can be substantially enlarged.

Definition 3.1.5. The single layer potential S and the double layer potential D are
given by
S = Ny, D = N7

Theorem 3.1.6 deals with the connection between the abstract Definition 3.1.5
and the explicit representations (3.4) and (3.5). The jumps [¢], [y1u] of a function
u e HL1 (]Rd\F) across I' were introduced in (2.119).
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Theorem 3.1.6. (a) For functions u € H 11 (Rd\F ) with compact support and f =
Liu [see (3.7)] we have Green’s representation formula

u=Nf—S(ywl)+ D (u) (3.10)

as a functional on Cg° (Rd).

(b) The operators S = Nyy and D = Nyi" have the representations (3.4) and
(3.5)forue L' (I') on R4\T.

Proof. Functions u € H 11‘ (Rd\F ) with compact support can be interpreted as
functionals on C*° (Rd) according to

U= (u,)2(ra) -
Applying Theorem 3.1.4, we then have

(LNM,V)Lz(]Rd) = (u,N’L’v)Lz(Rd) =U(N'L'v) = (LNU) (v)
=U (v) = (u, V)Lz(Rd)

forallv e C*® (Rd) and subsequently the equality LA u = u in the sense of a

functional on C*® (Rd). N Lu = u can be shown analogously.
The operator A can then be applied to Green’s third formula (2.122). With
Theorem 3.1.4 we then obtain the representation

u=Nf—Nys(yrul) + Nyi' ([ul).

Foru € C*® (]Rd) we have [yju] € L' (I"). Under these conditions we will show

that for x € R?\TI" we have the representation (3.4) for Yo- In the following, let S
and D be defined by the right-hand sides in (3.4) and (3.5). The representation (3.9)
gives us, along with Fubini’s theorem, for all v € L' (I') and w € C§° (R?)

o9 2y = (1o W)y = [0 ([, Bxmmwwan)as
- [Rd w(x) (/r v(y)G (x—y) dsy) dx = (Sv.w) 2 (ga)-

Letx € QT andU/ C Q7 be an arbitrary, compact neighborhood of x. Then Sv|; €
C® (U) (see Theorem 3.1.1). Since the restriction of Cg° (]Rd) on U is dense in
L? (U), we have the equality N'y) = S in x. The assertion for x € Q can be
shown analogously.

In order to prove the representation (3.5) for N7’ for x € R?\TI', we again
first consider the case x € Q% and a compact neighborhood 4 C Q% of x. Let
x € C&° (R?) be atest function with supp y C @+ and y = 1 onYf. Forv € L' (T)
and w € C$° (R?) we obtain
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N7y, XW)LZ(Rd) = (. ﬁN’XW)H(F)

:/ v (y) (m (/ 6(x—y))(w(x)dx)) dsy.
r supp X

Since the distance between (supp ) and T is positive, the kernel function G (x — y)
is smooth and the differentiation and integration can be interchanged. Fubini’s
theorem then gives us

WA ) oy = [ 700 ([ 20 (7756 6 w) )
= (Dv, )(W)Lz(Rd) .

We obtain the equality N'y7'v = Dv on Q7 because the restriction y C§° (]Rd) on
U coincides with the restriction C§° (R?)|,,. which is itself dense in L? (/). O

We will generalize Theorem 3.1.1 by proving that L+ Sv = 0 for all v €
H~Y2 ().

Proposition 3.1.7. Let —1/2 < s < 1/2andv € H™'/2+5(I"). Then LSv = 0 on
RA\T.

Proof. We use Definition 3.1.5 and obtain
LSv = LNy,v.

The mapping properties of the trace operator yo : H,\T* (R?) — H/2%5 (T) imply
the continuity of the dual operator

/ /
v B2 (D) > Hh (RY) = (HA (RY)) < (e (RY)) .
Therefore Theorem 3.1.4 becomes applicable and we obtain
LSv = yyv (3.11)

in the sense of a functional on C*° (Rd). Lety € C*® (]Rd\F) with suppy C
R4\ T". Without loss of generality we assume that supp ¥ C Q. From this we have
o = 0 and

(vov. W)Lz(Rd\r) =W vo¥)2qm) =0

and as a consequence LS = 0 on R?\T. O

Green’s representation formula (3.10) was shown for functions u with compact
support. We will prove a modified form of Green’s representation formula for func-
tions that satisfy the characteristic physical decay condition but do not have compact
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support. We will restrict ourselves to functions that satisfy Lu = 0 in R*\T". In the
following section we will anticipate a result and use the mapping properties of the
potentials S and D from Theorem 3.1.16:

S:H™Y? () — Hl})c (') and D: H'/? () — Hl{ (Rd\F) are continuous.
(3.12)

First, we will choose a sufficiently large a >0 with Q~ C B,. Let uc H 11
(Rd\I‘ ) with Ly = 0 in R4\ {I'}. For the boundary of the intersection of the
domains Q, := QT N B, we have 0Q, = ' U T, with T, := 9B,. Let the
normals on I' again point in the direction of Q% and those on I, in the direc-
tion of B := R4\ B,. The function u, := u in Bz and u, = 0 in B satisfies
ug € H} (R9\3,) and has compact support. Therefore we can apply Green’s
representation formula (3.10), which gives us

u=—S[yiu]l+ D[u]+v in B,\T,
(3.13)
0=-S[ywul+D[ul+v inB}

with
v:i= S, ((r1iwlp,) — Da ((ow)lr,)  inBaUB. (3.14)

Here, in (3.14), S, and D, denote the single and the double layer potentials for I,
while S and D in (3.13) denote those for I'. We define

v(x) in By,

v(x)+u(x) inB]. 3-15)

w(x):=

Combining the first equation in (3.13) with the first equation in (3.15) gives us
w=u+ S [yiu] — D [u] in Bo\T. (3.16)

The mapping properties of S and D [see (3.12)], the boundedness of B, and
Proposition 3.1.7 imply that

wlp, = vlp, € H' (B;) and Lw=0 in B,. (3.17)

Combining the second equation in (3.13) and (3.15) gives us, together with (3.16),
w=u+S[yul—Du]  inR\3Q,. (3.18)

It follows from (3.18) together with the mapping properties of S and D that w|q+ €

Hl. (QF)and Lw = 0in Q. With (3.17) this givesus w € H,!_ (R?) and Lw = 0
in R?. These ideas are summarized in the following theorem.
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Theorem 3.1.8. Letu € H} (R\I') with Lu = 0in Q™ U Q™. Then
u=—S[ywu]+Dyul +w inQ UQT (3.19)

with an L-harmonic function w € Hl(l)C (Rd).

Theorem 3.1.8 generalizes Green’s representation formula so that it applies to
functions that have unbounded support. However, the space H,._ (%) also contains
functions with an unphysical behavior for ||x| — oo. Ideally, for ||x|| — oo the
required behavior of  at infinity should imply w = 0. For such functions # Green’s
representation formula remains valid unchanged. We will carry out these ideas and
use the Laplace and Helmholtz operators as examples. We will also consider the
operator L under the condition that the coefficients satisfy apinc > ||b||2 Here amin
again denotes the smallest eigenvalue of the matrix A [see (2.99)].

Lemma 3.1.9. Let d = 3 and aminc > ||b||>. Then, for all ¢ € H~'/2(T) and
Ve H1/2 ("), there exist positive constants Cy, Cy such that

1S W)+ DY ®)] + [V (Sp) @] + [V (Dg) M) < Cre” I
for all x € R3 with ||x|| > a. Here a > 0 is chosen so that ' CC B, and

inf -yl > 1. 3.20
(x,y)érIl‘XBBa ”X y” - ( )

Proof. It follows from aminc > ||b||? that we have for the exponent of the fundamen-
tal solution in (3.3)

(b.2)5 — A Izlly < bl lzlls — zls y/e + B2 < — Jz
yim (\/c bl - ||b||A) ) V> 0.

From this we have for the fundamental solution under consideration

with

G (@)] < Coe™7171/ |z

This gives us the estimate

G (x—y)| < Coe? X = €y Ixl=lx—yD=vIxl < ¢, (marx eynyn) oI
ye

—: Cye 7N

forall x € R3\B, andy € I". Now let ¢ € H~/2(T") and ||x|| > a. Then
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IS0 )] < /F G (x—y)| | ()] dsy < Cae" /F o ()] dsy
< Gl giam e ™™ el g-120) = Cae ™ o)l g-1/2(ry -

The result concerning the double layer potential and the gradients of the potentials
can be proven analogously. O

The following lemma shows that L-harmonic functions on R? are always poly-
nomials for the coefficients under consideration.

Lemma 3.1.10. Let d = 3 and aminc > |b||> or ¢ = |b|| = 0. Then every w €
H}. (R3) with Lw = 0 on R3 is a polynomial. If ¢ = ||b|| = 0 the statement

remains valid for the space H'! (L, ]R3).

The assertion of this lemma follows from [80, Chap. XI, Part B, Sect. 2, Theo-
rem 1].

Theorem 3.1.11. Let d = 3 and aminc > ||b||*. Let the function u € H' (R3\I‘)
satisfy Lu = 0 in Q= U Q7. Then the representation formula (3.19) holds with
w=0.

Proof. The mapping properties of S, D imply S [yiu],D[u] € H.}. (R3\F).
Lemma 3.1.9 gives us the stronger statement S [yyu], D [u] € H' (R*\T). Accord-
ing to the conditions, the left-hand side in (3.19) is in H'! (R3\I‘ ) and therefore
the right-hand side is also in H! (R3\F ) Since the only polynomial for which

we H! (R3) is the zero polynomial, we have w = 0. O

Theorem 3.1.12. Let d = 3 and L = —A. Let the function u € H' (Q7) x
H! (—A, §2+) satisfy Au = 0in QT U Q™. Then the representation formula holds
with w = 0.

Proof. Choose a as in (3.20). For ||b|| = ¢ = 0, the fundamental solution and its
derivatives satisfy the inequalities

G @] < Ci |z

IVG )] < Cy 2|~ vz € R*\ {0}

It follows for all y € I' and ||x|| > a with Cr := maxyer (1 + |y||) that the
following inequalities hold

IG(x—y)| <Cilx—ylI™" < CiCr x|
IVxG (x—y)|| < C1CE|Ix|| 2,
10G (x—y) /ony| < Cy x—y| 7> < C1CE ||x[| 7%, (3.21)
| V<0G (x —y) /omy | < Co [x—y[ > < G2 |x]| 3.

From this one deduces, as in the proof of Lemma 3.1.9, that for all ¢ € H~/2(I)
and ||x|| > a
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1
1S )| s/r|G<x—y)||<o(y>|dsysclcrmfrwndsy
< G I 10l -2 - (3.22)

In a similar way one can prove forall ¢ € H~'/2(T"), v € HY/?(T) and ||x| > a
the inequalities
IV (S@) @)l < Ca x> @l 172y -
1Dy ()] < Cs|IxI 7> [Vl g1y - (3.23)
IV (DY) @I < Co x> 11l 1/2ry -
Note that the constants Cj, ... Cs are independent of a. Theorem 3.1.16 implies

[see (3.12)] that S, Dy € H!, (R3\F). From the boundedness of 2~ and Q, :=
Q1 N B, one deduces

Selgr- DVig,r € H' (B\I).

Let B; := R3\B,. If one combines the inequalities (3.22), (3.23) with the
definition of the H! (L, B; )-norm, it follows that (see Exercise 3.1.14)

Selgr € H' (L.BS) and Dylyr € H' (L, B;).

Finally, by the equivalence of the norms in H'!(Q,) and H! (L,,) on the
bounded domain €2, one obtains the property

Se.Dy € H' (Q7)x H' (L. Q7). (3.24)

The conditionu € H' (Q7)x H! (L, §2+) combined with (3.24), Theorem 3.1.8
and Lemma 3.1.10 gives us that the L-harmonic function w is a polynomial with
we H'(Q7)x H' (L,Q"). Hence w = 0. O

Theorem 3.1.13. Let d = 3 and Lu := —Au — k?u with a positive wave number'
k > 0. Let the space H' (L, Q) be defined as in Remark 2.9.3. Let the function
ue H'(Q7) x H! (L, Q+) satisfy Lu = 0in QT U Q™. Then the representation
formula holds with w = 0.

Pmof. The statement follows from [80, Chap. XI, Part B, Sect. 3], as no plain wave
!X with ||k| = k is contained in H! (L, Q7). O

Exercise 3.1.14. Let ¢ € H='/2(T') and v € H/2 (T). Show that the single and
double layer potentials for the Laplace problem satisfy

Soe H' (L,B}) and Dy € H'(L,B}).

Exercise 3.1.15. Let ¢ € H™'/2(I") and v € HY2(T), and let S be the single
and D the double layer potential for the Helmholtz problem. Show that S ¢ and D
then satisfy the Sommerfeld radiation conditions (2.133).

! The wave number is a scalar quantity which characterizes the oscillatory behavior of time periodic
waves. It is proportional to the reciprocal of the wave length.
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3.1.2 Mapping Properties of the Boundary Integral Operators

In this section we will derive the mapping properties of the potentials and the bound-
ary integral operators. The definitions of S, D, V, K4+, K ;E, W can be found in
Definition 3.1.5 and (3.6).

Theorem 3.1.16. Let @ C R3 be a bounded Lipschitz domain with boundary
I' := 0Q. The operators S, D, V, Ky, K_, K\, K and W are continuous for
|s] < 1/2:

(i) S H71245(T) — HLF* (R?).

(ii) D : HY2T$(T) — H} T (R3\I).
(iii) V : H~Y2+s () - HY2+s ().

(iv) 0 € {— +}: Ko : HY2tS (T) > HY2+s(T).

(v) 0 €f{—~+}: K/ : H7V/2+s (') - H~'/2+s(I).

g

(vi) W HY2+s () — H~1/2+s (),

Proof. By Definition 3.1.5, finding the mapping properties of S reduces to finding
the mapping properties of A and y{. The trace theorem implies the continuity of
Yo : HL* (]RB) — H /275 (I") for |s| < 1/2. This in turn implies the continuity of
the dual operator y, : H*~'/2(I') — HC;;I'}'{S (R?). Combined with Theorem 3.1.2
this gives us

S:HSV2() — HLT (R3).

loc

The mapping properties of the operator V' follow directly from the mapping proper-
ties of the trace operator yo : H\T* (R®) — H*F1/2(T).

We now consider the double layer potential. This case can be reduced to the
previous case by representing the double layer potential in terms of the single layer
potential. We use the solution operator 7" from Sect. 2.8 for the interior problem and

define, for given boundary data v € H'/2*$ (T'), the function u € H} (R3\I') by
_ | TvinQ~,
1 0 inQt.

Note that we have for the jumps of # and y;u across I'

M=ut—u =—v and [yu] =ytu—yju=—yju

We define f € L% (R?) by

comp

Green’s formula (3.10) can be applied, as u has compact support, which gives us the
relation
u=Nf+ Syju— Dv.
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If we solve for Dv we obtain

DVZN(_AOTV) +S(yT)v— (TOV), (3.25)

where (v—,v4)T is an abbreviation for v_y_ + v4 y+ with the characteristic func-
tions y—, y+ for the domains 7, %. The mapping properties of S, A" and y; T
(see Theorem 2.8.2) imply that

(_QT) 2 N 2 3
- L& (RY) > H (R),

comp

H1/2+S (F)

HY?5(T) "f_>T H1/2+s (T S, gi+s (R3),

(5)

H1/2+S (F) = H1+S (]R3\F) .

Combined this gives us D : HY/?+5(I') — HI(I)QLS (R3\F). By Proposition 3.1.7
one obtains S : H~ Y2t (') — Hi"” (R3\I‘). Let L be as in (2.123). From
LT = 0in Q it follows that (7,0)T : HY?>T(I') — H}*$ (R3\T'), which
proves that D : HY/2+5(T') — H;*5 (R3\T).

The continuity of the operators K4, K Q_L, W follows from the continuity of
the trace operators yi® : H\T* (Q%) — HSTV2(T) and yit : H; T (QF) —

Hs~1/2 (T') (see Theorem 2.6.8 and Theorem 2.8.3) combined with the mapping
properties of S and D. O

Corollary 3.1.17. From the proof of the mapping properties for the double layer
potential D and Proposition 3.1.7 we have LDv = 0 in R3\T for all v €
H'2+S (Tyand —1/2 <5 < 1/2.

We close this section with a remark on the optimality of the interval |s| < 1/2 in
Theorem 3.1.16.

Remark 3.1.18. (a) The restriction |s| < 1/2 in Theorem 3.1.16 is a result of the
representation S = N'y( of the single layer operator, used in the previous proof,
as well as the range of the trace operator g for Lipschitz domains (see Theo-
rem 2.6.8). In general, this interval cannot be enlarged for Lipschitz domains,
which means that the interval |s| < 1/2 cannot be determined more accurately
with the method chosen for the proof (see [72, 162]).

(b) The continuity of the operators in Theorem 3.1.16 can also be shown for s =
+1/2 for the Laplace operator. The proof requires methods from the area of
harmonic analysis and goes beyond the scope of this book. It can, however, be
foundin, e.g., [143,231].

(c) If the Lipschitz boundary T is globally smooth, ' € C®°, the trace operator
Yo : HE. (RY) — H'"Y2(T) is continuous on the entire range £ > 1/2 and

loc

Theorem 3.1.16 is then valid for all s > —1/2 (see [170, Chap. 4]).
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(d) If the Lipschitz boundary T' = 0Q is piecewise smooth, more specifically, if

there exists a finite number of disjoint, relatively open surface patches I'j C I’
q

with 1 < j < q that are smooth, I'; C C, and that satisfy I = UF_J

j=1
then the upper bound of the interval on which the trace operator in Theo-
rem 2.6.8 is continuous can be extended beyond the interval of indices given (see
[39, 79]). From this we have the mapping properties in Theorem 3.1.16 for all
—1/2 < s < s¢ withan sg > 1/2.

3.2 Regularity of the Solutions of the Boundary
Integral Equations

The derivation of a priori convergence rates for discretizations of the boundary inte-
gral equations is based on regularity properties of the continuous solutions. More
specifically, this means that the solution of the associated integral equation should
not only exist in the energy space (s = 0 in Theorem 3.1.16) but should also be
sufficiently smooth. The regularity theory for boundary integral equations follows
from the regularity of the solutions of the associated partial differential equations.
Both of these questions go beyond the scope of this book and we will only present
the relevant results. Appropriate proofs can be found in, e.g., [72, Theorem 3], [162,
Theorems 7.16, 7.17], [79, 113, 145].

For the formulation of regularity results we distinguish between the following
cases: a globally smooth surface, a piecewise smooth Lipschitz polyhedron and a
general Lipschitz surface.

Definition 3.2.1. A domain Q C R3 is a Lipschitz polyhedron if @ € C%!
and there exist finitely many disjoint, relatively open surface patches I'; C T,
q
1 < j < g that are smooth, I'; € C*, and satisfy I' = UF_J
j=1
Theorem 3.2.2. Let Q@ C R3 be a bounded domain with a globally smooth
boundary ' = 0Q2 € C*:

(a) Let ¢ € H"Y2(I') and Vo = f € HY?*S(T) for an arbitrary s > 0. Then
@ € H™Y/2+5(T) and

@l z—1724sy < C (1f N gz+sy + lell g-12(r)) -

(b) Let ¢ € H™'2(T") and Kl o =fc¢ H~Y2%5(T) for an arbitrary s > 0.
Then ¢ € H='/2+5 (") and

||‘/)||H—1/2+~Y(1") <C (||f||H—1/2+s(r) + ||</’||H—1/2(r))~

The analogous result holds for the operator K’ .
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(c) Lety € HY2 (') and K1y = f € H'Y?*S(T) for an arbitrary s > 0. Then
v € HY2S (') and

W g124s@y < € (1L laz+esay + 1V 1 m12@)) -

The analogous result holds for the operator K_.
(d) Lety € HY2 () and W = f € H~V/2%S(T) for an arbitrary s > 0. Then
v € HY2S (') and

Wl g1/24sy < € (1f =124y + 1T g172a@y) -

The constants C in the above-mentioned inequalities depend on s.

In the following theorem we consider surfaces of Lipschitz domains and bounded
Lipschitz polyhedra.

Theorem 3.2.3. (a) Let T" be the surface of a bounded Lipschitz polyhedron Q2 C
R3. Then there exists some so = so (I') > 1/2 such that the regularity and the
a priori estimates from Theorem 3.2.2 hold for all 0 < s < sy.

(b) For general Lipschitz domains this statement only holds for s = 1/2.

3.3 Jump Relations of the Potentials and Explicit
Representation Formulas

In this section we will first derive the jump properties of the potentials and their
conormal derivatives on an abstract level, after which we will give an explicit
representation. The approach we have chosen here avoids the calculus of pseudo-
differential operators, which is used in [144], for example, for the derivation of
one-sided jump relations.

3.3.1 Jump Properties of the Potentials

The single and double layer potentials have characteristic jump properties on the
surface I'.

Theorem 3.3.1. Let Q2 be a bounded Lipschitz domain with boundary I' = 0S2. The
single and double layer potentials satisfy for all € H=Y2 (T') and € H'Y? (")
the jump relations

[Sp]=0. [Dyl=vy inH'Y*(),
[r1S¢]l = —¢. [1DY] =0in HY/2(T).
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Proof. The first jump relation [S¢] = 0 is a direct result of Theorem 2.6.8 and the
mapping properties of S’ (see Theorem 3.1.16).

To deal with the jump of the normal of S, weletp € H~1/2 (I") and setu = S¢.
Theorem 3.1.16 combined with Proposition 3.1.7 imply that u € H} (R4\T) and

Lu = 0in R4\T. By using Green’s second formula (2.112) with v € Cs° (Rd) we
obtain, for 2 € {Q_, Q+},

— (u, L/V)LZ(Q) = o {(You. V1v) 12y — (Y14, YoV) 12(r) } -

If we add both equations (for @ = Q™ and Q = Q™) while using [v] = [y1v] =0
andu € L? (]Rd) we obtain

loc
— (u, L/V)Lz(Rd) = —([ul. V) 2y + (1ul . yov) L2(ry -

We have already shown that [u] = [S¢] = 0 and thus obtain

(y1ul . yov) 2y = — (u. L,V)Lz(Rd) . (3.26)

Combining (2.116) with the definition of S (Definition 3.1.5) and Theorem 3.1.4
we obtain

(u, L/V)LZ(Rd) = (Lu,v) 2 (gay = (LS@.V) 2 (pa) = (LN Y, V)Lz(Rd)
= (v99. V)LZ(]Rd) = (¢, Yov) L2(r) (3.27)
and combined with (3.26)
(r1Sel. vov) L2y = — (@, Yov) L2(r) -
The assertion follows, as yoC§® (]Rd) is dense in H'/2 (") (see Lemma 2.8.4).
To deal with the jump properties of D, we start in the same way as for the single

layer potential with an arbitrary function ¢ € H'/2 (T") and set u = D¢. As before,
this time by using Corollary 3.1.17, Green’s second formula gives

— (u. L'V)Lz(Rd) = —([u]l, 1) L2y + ([Y1ul . vov) L2(1y
forall v € CZ° (R¥). With the definition of D (Definition 3.1.5) we obtain

(M,L/V)Lz(]Rd) = (LM,V)Lz(Rd) = (LD(p,V)Lz(Rd) = (LN]’H,(/)’V)LZ(R‘I)
= (ﬁ/¢7V)L2(Rd) = (%ﬁ")ﬁ(r)

and therefore
([y1Del, yov)L2ry = ([De] — @, V1V) L2(r) - (3.28)
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Since yoC§° (Rd) x y1C§° (]Rd) is dense in HY2(I') x HY2(T') (see
Lemma 2.8.4) each of the two sides in (3.28) has to be equal to zero. This, how-

ever, gives us exactly the two stated jump relations for the double layer potentials.
O

3.3.2 Explicit Representation of the Boundary Integral
Operator V

Theorem 3.3.1 demonstrates that the one-sided limits of the potentials and their
conormal derivatives in general define different functions on I'. For the numerical
solution of boundary integral equations it is essential that the integral operators can
be evaluated on the surface I'. For this, the representations of the integral operators
as one-sided traces of potentials, i.e., as one-sided limits, prove to be unsuitable. We
have seen for the single and double layer potentials that for sufficiently smooth data
v the explicit representation (3.4) and the abstract definition 3.1.5 coincide.

The functions that we use for the discretization are always bounded, i.e., in
L°° (T"). Under this condition the integral operators have an explicit representation
on piecewise smooth surfaces. In order to determine the limits of the potentials we
need estimates of the fundamental solution G [see (3.3)] and its derivatives. These
depend on the coefficients A, b and ¢ in the definition of the differential operator L
[see (3.1)] as given in (3.3). With regard to (3.3) we introduce the function

g R > C,  g@:=exp((bz)y —Allz]y)

with A as in (3.3). The behavior of this function depends on the coefficients A, b
and c.

Lemma 3.3.2. Let amin again be the smallest and amqx the largest eigenvalue of A:

1. ¢ > 0. Then for all z € R4

c
lg (2)] < e Plzlla with p 1= ——————
Ve +2bll,

2. ¢ =0. Forall z € R? we have
lg (@) = 1.
3. ¢ <0andb = 0: Then we have
lg@@|=1 VzeR?

4. ¢ < 0andb # 0. Then the function g diverges exponentially in the direction of
b; more precisely, for all o« > 0 we have

lg (ab)] > e min{lcl/2, bR}
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Proof. For case 1. we have
A= /IbI3 +c=blls+

and thus

¢ ¢
> |bl[, + ———
2 b
Iblls + /IbI2 + ¢ Ve +2]bll,

(b.z)s —Alzlls < [blls llzlla = (Iblls + p) |zl = —pllzll5 <O.
Case 2: For ¢ = 0 it follows from the Cauchy—Schwarz inequality that
g (z) = ePa-blallzls < o0 — 1
Case 3: For ¢ < 0 and b = 0 we have

g ()] = ‘e—ingIIA - 1.

Case 4: First let — ||b||i < ¢ < 0. We choose z = ab with ¢ € R.y. In the same
way as before one can show that

c c
A= IbIR +c = bl + —— = Iblla + 2l
Iblls + +/lIbllx +¢ A

From this, with z = «ab, it follows that

2 (2) = g (ab) = ¢IPIalbls—h) 5 yalel/2

and the function diverges exponentially for « — co.

Now let ¢ < — ||b||§ < 0. In this case we have A = —i/|c| — ||b||§ and

therefore for all z € RY

2
AL

g @] = |

O

Fundamental solutions, the coefficients of which correspond to case 4 in Corol-
lary 3.3.2, induce potentials with exponential growth in certain directions for
|x|]| — oo. From a physical point of view, these potentials are not very important
and will no longer be examined.

Lemma 3.3.3. Letb =0o0rc > 0.

(a) Forall 0 < & < 1 and R > 0 there exists a constant C < oo such that for all
y € I' and all x € Bg (y) we have
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C

Gx-y)|<———.
Ix —y| 92+

(3.29)

(b) Under the additional assumption “T' € C? in a local neighborhood of y” we
have

— |(ny. x —y)| 1 )
Y1yG (X =Y)| + |y1,yG (y = %) §C< + =
75 [ +ln | e A P

forally € T" andx € Uy where Uy denotes an arbitrary, bounded neighborhood
of y.

Remark 3.3.4. For d > 3 we can choose ¢ = 0 in Lemma 3.3.3. In two spa-
tial dimensions the kernel function has a logarithmic singularity and ¢ = 0 is not
admissible.

Proof of Lemma 3.3.3: We will only prove the assertion for d = 3 and refer to [102]
for the general case.
Corollary 3.3.2 implies the uniform boundedness

|e(b,Z)A—MIZIIA |
v/detA

for the considered values of the coefficients. From this follows (3.29).
We will now study the derivatives of the fundamental solution. We have

<C VzeR4

1 A7z

V,G(2) = ——————— +
’ 47 /detA |z||¢

R (z). (3.30)
The remainder can be estimated by
C
IR1 @) < ———5+
|| z || d—2+¢

with a suitable ¢ € 0, 1[. The definition of the modified conormal derivative (2.107)
leads us to the decomposition

ViyG (x—y) = y1,G (x—y) +2(n,b) G (x—y), (3.31)

and because of (3.29) it suffices to consider the first summand. Using (3.30) this

gives us
|(ny,x—y)| 1 )
Y156 (X—Y) §C< + — .
s | Ix—yld  x—yl9Fe
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We use the representation of the single layer potential from (3.4), and for ¢ €
L% (') we define the extension of S on R? by

(S¢) (x) == /F G(x-y)o(@yds, VxeR? (3.32)

Theorem 3.3.5. Let ' be the surface of a bounded Lipschitz domain Q@ C R%. For
any ¢ € L (I"), the integral in (3.32) exists as an improper integral and defines a
continuous function S¢ on R4,

Proof. The continuity of S¢ in R?\I" has already been determined in Theo-
rem 3.1.1.

We use the notation from Definition 2.2.7. Let x € I" and Uy be a d -dimensional
neighborhood of x for which there exists a bi-Lipschitz continuous mapping
X : Bo — Ux. Here B; again denotes the d-dimensional ball with radius 2 around
the origin, and Bg is defined as in (2.71). Without loss of generality we assume that
x (0) = x. The integral in (3.32) is split into fF\UX + fFﬂUx and, for the first part of
the integral, the continuity in x follows as in the proof of Theorem 3.1.1.

In local coordinates the second part of the integral gives us
0= [ Ga-pewds = [ GuO-1@9@
rnuy BY

withg (§) ;=g (§) (po y) (§) € L*® (Bg) and the surface element g (¥) (see 2.2.4).
The Lipschitz continuity of the surface implies the existence of a constant C; > 1
that depends only on I', with

CrHE=Fl < lx® - x@I = Cilx=3]  VX¥e€ B

Combined with (3.29) we obtain the following estimate for an arbitrary 0 < ¢ < 1
N Cy
|G (x (0) = x ()] =< W—_Z“ (3.33)
y

for all § € BY\ {0}, where C, depends only on Cy, d, ¢ and A. This proves that

S (x) < sz Mdi’-

~nd—2+
N

The regularity of the parameterization combined with ¢ € L° (T") result in the
existence of a constant M < oo such that

sup ¢ ()] < M.

5 0
YEB;
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With this we have |
S (x) < CzM/ —————dy.
BY [§1°7*°

The integrand on the right-hand side defines an integrable upper bound (see Exer-
cise 3.3.6) so that the right-hand side in (3.32) exists as an improper integral.

In order to prove the continuity of S, in x we consider a sequence of points
(Xn),en in Uy that converges to x. The associated sequence (Xp), ey in Bz con-
verges to zero. Without loss of generality we assume that (X,),eny C Bi. Let
A eCge (Rd) be a cut-off function with 0 < A < 1 and

A=1lonBY and A=0onR?\Bs.

‘We have to show that

. AUN / AO e
n=oco Jra-1 ||%, — §||47>*¢ R ||y 472t

The integrand on the right-hand side defines the function f. The integral on the
left-hand side can be written as

[, 385 a5 [ nwas

_ od—2+
=yl ’

Note the inclusion

|J supp A (- + %) C Ba.
neN

If we use the fact that f;, is integrable, converges to f almost everywhere and is
bounded above by the integrable function

I§17“72*9 if§ € By
0 otherwise

gy :=§

we can apply Lebesgue’s theorem of dominated convergence and thus prove the
statement. a

Exercise 3.3.6. Let By be the (d — 1)-dimensional unit ball and 0 < & < 1. Show

that
[
.4y
By [[§]1972

exists as an improper integral. Hint: Use polar coordinates.
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3.3.3 Explicit Representation of the Boundary Integral
Operators K and K’

We will now turn our attention to the one-sided traces of the double layer potential.
The derivation of explicit representations of the traces ygr D,y D, y1+ S, vy S is,
technically speaking, more complex than for the boundary integral operator V. We
will limit this discussion to the essential arguments and refer to [102] for details.

Explicit representations have a great significance, especially for the numerical
solution of the integral equations. For the numerical treatment, the boundary I is
always assumed to be piecewise smooth and usually one uses piecewise smooth
functions for the discretization. Keeping this in mind, it is therefore only neces-
sary to derive the explicit representation formulas under these conditions. These
assumptions will greatly reduce the technical difficulties in the following section.
For a more general discussion we refer to [162, Chap. 7].

Assumption 3.3.7. The surface T" belongs to the class szw (see Definition 2.2.10).

This assumption on the smoothness implies that the conormal derivative of the
fundamental solution G is improperly integrable.

Lemma 3.3.8. Let T € C2, and ¢ € L™ (T):

(a) The function ¢ (y) y1,yG (x —y) is improperly integrable on T" with respect to y.
(b) If T is smooth in x € T then the function ¢ (y) y1xG (X —Y) is improperly
integrable with respect to'y.

Proof. Lemma 3.3.3 implies the existence of an ¢ € |0, 1[ with

— |(my. x —y)| 1 )
YiyG (x—y) §C< + — :
= | Ix—yld  x—y]9Fe

It suffices to consider a local neighborhood Uy C R? of x to determine whether the
function is integrable or not. If we choose a sufficiently small Uy there exist parts
Iicl,1 <i <q,with I} € C2 and

q
UnT = JWnTy).

i=1

On each of these parts I'; we have (see Lemma 2.2.14)

| (y).x—y)| < C |x—y|?

and therefore

o () 713G (x—y)| < CM |x—y|"“972%  with M :=suple (2)].

zel
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Hence, as was shown in the proof of Theorem 3.3.5, we have found an improperly
integrable upper bound.

In case (b) we need the smoothness of I" in x to be able to define the conormal
derivative yj x pointwise. In this case we can use Lemma 3.3.3 in the same way as
above to find an improperly integrable upper bound. O

This lemma shows that

(Ko) (x) := F)77,yG (x—y)o(y)dsy xeT,
(3.34)
(K'p) (x) := / Y1xG (x—y) @ (y)dsy I smoothinx € T
r

are well defined under the condition that ¢ € L*° (T").

Corollary 3.3.9. Let T' € C2,. The mappings K and K’ from (3.34) map L> (I)
pw

to L® (T') continuously. The continuous embedding L*>° (I') C L?(T") results in
the continuity of the operators

K:L® () — L®(T), K:L®(T)— L2(T),
K :L®([T)— L® (), K': L®(T) - L2(T).

Proof. Let ¢ € L*° (I"). As in the proof of Lemma 3.3.8 one can deduce that

1
Ix =yl

Ko (9] < 0]l ooy /F (3.35)

d—2+e¢ dsy

for all x € I'. From the proof of Theorem 3.3.5 we have the boundedness of the

integral
1
————dsy < C
/rux—yn“‘“e '

with a constant that does not depend on x.

The operator K’ can be estimated in the same way in all smooth points x € T’
by the right-hand side in (3.35). Since the set of all non-smooth points has zero
measure, the mapping properties from the assertion result in this case as well. [

The existence of K¢ and K'¢ on the surface of I" does not in any way mean that
these functions are limits of the potential D¢ as a transition from Q% on T'. In the
following these one-sided limits will be put into relation with one another.

The utilized geometric construction is illustrated in Fig. 3.1. Let S (x, r) be the
surface of the d-dimensional sphere around x € R with radius r > 0. We set
H (x,r) := S(x,r) NQ~. The functional J : R¢ — [0,1] is related to the
principal part of the differential operator L [see (2.98)] and is defined by

r 1
J (x) := lim —/ —dsy. (3.36)
r=0 g +/det A JH(x,r) ||X—y||fi Y
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Fig. 3.1 Intersection te,
H(x,r)= S(x,r)N Q™ and
corresponding choice of the
orientation of the normal
vector with respect to the
local coordinate system

R,(0,r)

K(x,r)

S(x,r)
n(y)

Here w, denotes the surface measure of the unit sphere in R4, ie., wy = 2m,
w3 = 4m, etc. Before we present the properties of J we will need a preparatory
lemma.

Lemma 3.3.10. For all nonsingular matrices B € R2*¢ we have

1 wyq
ds, = . (3.37)
[sdl Bx|? |detB]

Proof. We define the function ¢ : R — R by r — r2exp (—r2). On the one hand
we have

d—1
dee] [ CUXD e e tB|/ / AWk T dsydr
R |Bx||? sa_1 rd |By|“
1 1
_ |detB|/ —ddsyf 0, 1 |detB|/ ———ds,
Sa—1 |IByll 0 r 2 Sa—1 Byl
and on the other
deep) [ 2UXD, :/ o ([B7'x]) , / / |}B— D
R |[Bx]? R ||x| Su-1 Iry| @ rimd =

/S/ HB ), rds, = 2%,

which proves the assertion. O
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From this lemma we have the estimate

r 1
0< —/ ——gds
wg~detA JHx,r) ||X - yni !

r 1 1 1
< dsy = / dsy, = 1. (3.38)
wq+/detA [S(x,r) Ix—yl¢ " wgvdetA Json ¢

We will show in Lemma 3.3.11 that the limit in the definition of J (x) exists and
that we therefore have J (x) € [0, 1].

The conormal derivative of the principal part of the double layer potential,
applied to the unit function, coincides with the functional J up to a sign. The
principal part of the fundamental solution is defined by

1
log ford =2,

A/ z

GO (Z) = 2 detzi\ ” ”A 1 (339)

ford >3

(d —2) wgV/detA ||z| 472

and the principal part of the double layer potential is defined by

(Do) (x) := [F Y1yGo (x—y)v(y)dsy xe€RI\TL. (3.40)

Lemma 3.3.11. The functional J has the representation
J (x) = —/ Y1,yGo (X —y) dsy, (3.41)
r

while for yy in (3.41) one can choose y1+ aswell as y7 .

Proof. (Schematic proof) The proof for x € R4\T" follows from Green’s formulas
by a suitable choice of the functions u and v. We refer to [102] for the details and
restrict ourselves to the more interesting case x € I'.

The normal field to H (X, r) is chosen according to

@)= E-x)  VECH ()

and thus y; is defined on H (x,r) by y1 () := (An,ygrad-). Let Q=
Q7\ B, (x). By applying Gauss’ theorem (for sufficiently small r > 0) to 2~ and
by using the equality LoGo (x —-) = 0in 7, we obtain

/ Y1,yGo (x —y) dsy = / Y1,yGo (X —y) dsy.
'\ B (x) H(x,r)

The theorem of dominated convergence implies that we can let r — 0, i.e.,
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/ Y1,yGo (X —y) dsy = lim Y1,yGo (X —y) dsy
r r=>0 JH(x,r)
T r / 1 d J %)
= — li1m Sy = — X).
r=0 wg/detA Juer Iy — x4

O

Corollary 3.3.12. We have

0xeQt,
JX)=31xeQ,
%x € I and I is smooth in x.

Let (X;:—)neN and (x;)neN be sequences of points in QV and Q~ respectively that
converge to a point X € . Then we have for o € {—, 4} the relation
lim J (x) = - Go(x—y)dsy — (L +7 (0 (3.42)
Jim J(x;) = F)/l’y o(x—y)dsy 5 X) | . .

Proof. For x € Q7 and a sufficiently small > 0 we have H (x,r) = @ and
the integral in (3.36) equals zero. For x € Q7 and a sufficiently small » > 0 we
have H (x,r) = S (x,r) and the result follows from (3.38). We now need to con-
sider the remaining case x € I' and I' smooth at x. Since the integral in (3.36) is
invariant under rotation and translation of the coordinate system, we can choose
a Cartesian coordinate system (Ei)l-d=1 with origin x and the first d — 1 coordi-
nates in the tangent plane at x € I'. The component &; points towards Q7. Let
T(,r):=1{ €S (0, r):&; > 0} be the upper half sphere and

Ri(0,r):=T(0,r)\H(0,7), Ry (0,r):= H (0,r)\T (0,r).
The smoothness of the surface at x implies that
IRy (0,7)] + |R2(0,r)| < Cr.

From this we have

r [ L r / Ly
—_— Ay = ——— —Aas
wgVaeA Jun |x—y|¢ " wiv/detA Jaon g4 :

- 1
_ s, (3.43)
wg v/ detA /;"(O,r) H

r 1 r 1
N _/ LI —/ . ds.
wa et A Jrom) [E] wgv/detA Jr 0 ||E]|4



3.3 Jump Relations and Representation Formulas 127

It follows from the symmetry of S;_; that the integral (3.37) over the half sphere
T (0,1) is equal to wgz /(2 detB). As in the proof of (3.38) it follows that the first
term in the right-hand side of (3.43) is equal to 1/2. The other terms tend towards
zero for r — 0 since

r 1 1
—— —dsg| + / dsg|p < Cr.
w4 /detA /Rzm,n lEns ‘ Ri0) (€]
One obtains the second equality, i.e., (3.42), by using Lemma 3.3.11. O

Lemma 3.3.8 implies that the double layer potential is defined as an improper
integral on the surface of I'. The one-sided limits K+ and K ;: also exist, as given
in (3.6). The relation between these three functions on I' is given in the following
result.

Theorem 3.3.13. Let T € C2, and let (x;}),
points in Q1 and Q™ respectively that converge to x € T. Let the density
¢ € L (T") be continuous at x. Then we have for the double layer potential and
o € {—, +} the jump relations

and (X;)n en be sequences of

ol —1

Jim (00) () = [0 756 6= ds+ (T T 0) 0. G4

Proof. Let 0 € {—, +}. We first consider the statement for the principal part Gy of
the fundamental solution G [see (3.39)] and the associated double layer potential
Dy [see (3.40)].

Forx € T and £ € R? we define

10® = [ 0@ =0 @) 7,60 -
and for £ ¢ T obtain the representation

(Dog) (§) = —p (x) J (&) + Vo (§). (3.45)
Next, we replace D and G in (3.44) by Dg and G with, consequently, 7 = y;. By

Corollary 3.3.12 and (3.45) the resulting right and left-hand sides of (3.44) have the
representations

0 0+ ([ 71360 6=y + T 47 ) = v (9 (0 Jim J(x7)

and
9l J () + Jim ¥ (<)

respectively. Therefore it suffices to show that lim, o0 Yo (X3) = Vo (X).
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For the difference function we obtain the estimate

|I//0 (x) - I'ZIO( )| wdm/ Xn?X y dSy
with
(n(y).x—y) (n(y).&-y)
k(Ex.y) = _ o) -0 X
RGO P I B

The limit x; — X, is determined by the behavior of the kernel function k for§ — x.
For this, the integral over I is split into an integral over I'\ Bs (x) and I' N B (x)
with a sufficiently small § > 0. For § — x and y € I'\ Bs (x) we clearly have
limg_x k (§,x,y) = 0 and thus

lim k(&,x,y)dsy =0.
§—>x JT\Bs(x)

The domain of integration I'N Bs (x) is further split into smooth parts. The following
construction is illustrated in Fig.3.2. For this let 7 be a panel with x € 7 and a
smooth extension t* (see Definition 2.2.9). For the discussion on convergence we
may assume without loss of generality that all x{ are contained in Bj (x) and that
for every § € {x : n € N} there exists an orthogonal element £; € t* such that

E—§ =0lE-§1n(L). (3.46)

The proof is given once the

Auxiliary Assumption:

I(§) :=/ k(& x,y)dsy =0 for§ - x
TN Bg(x)

has been proven.

V‘ ﬁ.
Fig. 3.2 Point £ which Q g
converges towards x € .

The angle condition implies

that the angle 8 is bounded

from below away from 0. The

intersection of the concentric

circles K;/; with t defines

the subsets ;
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Case a: We will first consider sequences that satisfy an angle condition, i.e., there
exists some « € ]0, 1[ with

1§ =&Lll = «I§ —x]| Vé e {xy ineN}. (3.47)

For sufficiently large n € N there exists some m = m (n) € N with

b (3.48)
4m — ~ 2m

where b > 0 is the smallest number such that T C Bj (x). In the next step 7 N Bs (X)
is decomposed into m parts

Tm :=1N By (X),

(3.49)
T,'ZZTQ(BQ_(X)\B%(X)) l<i<m—1.
We then have
m
tNBs®)=|Ju. |ml=Cm'™¢  |u|=<Ci™? forl<i<m-—1.
i=1
(3.50)

The integrals over these parts are denoted by

T :=/ k (x7.,x,y) dsy,

T

while we use the convention that integrals over sets of zero measure and over empty
sets are equal to zero. Finally, we require the parameter

p(B) :=supilo (n) —e @] :ln—x|| < B}, (3.51)

which converges to zero for § — 0 because of the continuity of ¢ in x. It follows
that

m
1§ <) T.
i=1
We begin by estimating the kernel function on t,, and use Lemma 2.2.14, (3.51) and
the equivalence of the norms |||, ||-||5 to obtain
b 1 1
k(&x.y) < Cp (—)( = +’ e ) (3.52)
M7\ x =yl IE=ylls

We estimate the denominator of the second summand
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16 = ¥I% = g = ¥I” = ¢ (1§ — £l = 21( — £1.62 — ¥ + IEL — ¥I)
(3.53)
The middle summand in (3.53) can be estimated by using Lemma 2.2.14 and (3.46),
so that

[(E—EL EL—y)| = E=ELll [ (51) . EL—y)| <C [[E=x] |EL—yI* <C8 [|EL =y .

Therefore, for § < (4C )_1, we have shown that

2
ls=315 = lg-y1P =5 (160 + lewy?) 5 So? 1 —xi? = § (22 )

Finally, we obtain the inequality

~ (b
k(. x,y) <Cp (n—q) (

This means that

~ b 1 myd—1
T, =/ k (x2,x,y)ds §Cp(—) /—ds + | — .
m o (n ) y m r ”X_y”i_z y |m|<0l)

As has already been shown in Theorem 3.3.5, the integral in the above inequal-
ity is bounded. Since Cm'~¢ forms an upper bound for the surface |z,,|, from
p (b/m) — 0 it follows that T,,, — 0 for m — oo.

For the remaining terms 7;, 1 <i < m — 1, we use the decomposition

n@y).x—y) M(y).5-y)

1
d_
Ix—yl$ 2

Ix—yl4 e - yI4

_nw.x—§ ( 1 ) L mm.x-y)
vz \x—yls  TE- NA E:m—yn “lE—ylls!

=851+ 8,.

The second summand can be estimated by the reverse triangle inequality

|52|<IIIE—yIIA IX—yIIAIZ |X—Y||
T Ix=ylalE=yla 2 x—ys T e —yik!

d
X — &l

=C d—k k’
= I =y E =y

so that on t;
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Ix—¢l |~ Ix—&| -
IS1 4 82| = 7 +tCD . =57
lE—yld 2 Ix—yldF e —yIk

is proven. If we apply the inequalities (3.48)—(3.50) and

1 1 1 i +1\F 1
_ vk = vl — I1E — x|l = k= b i+1\k
&=yl lIx =yl — 1§ — x| (L _ L) (1—5th
i+1 2m

i+1\F
<(2
<(57)

to 7; we obtain

(i +1)?
m

s® <C

with a constant C that depends only on A, b and d . From this we have, with (3.50),

Zﬂs%Zp(i)(’“) s%gj () (3.54

i=1 i=1

Since p (b/ i) is a null sequence the right-hand side in (3.54) converges to zero for
m — oo. Because of (3.48) we also have m — oo from x) — x.

Case b: The proof of the auxiliary assumption for sequences that do not satisfy
an angle condition of the form (3.47) requires a more complicated decomposition
of the surface element 7 and will not be carried out here. Instead we refer to [102,
Theorem 18] for details.

The proof for the general double layer potential is based on the fact that the
singularity of the difference function

Y1y (Go (x—y) = G (x—Y)) (3.55)

is reduced and therefore that the operator which is associated with the difference
kernel (3.55) can be continuously extended to R?. Again we will not elaborate and
refer to [117, Lemma 8.1.5] and [102, Theorem 41]. O

We have already mentioned that the explicit representation of the boundary inte-
gral operators is essential for their numerical solution. In Chap. 4 we will focus on
discretization methods, for which the boundary integral operators have to be applied
to bounded, piecewise smooth functions. The resulting functions will always be
interpreted as L2-functions, the values of which are always determined up to a set
of zero measure. Under these conditions Theorem 3.3.13 can be simplified. We will
use the notation from Definitions 2.2.9 and 2.2.12.

Corollary 3.3.14. Let T € szw and ¢ € CplW (T). Then (3.44) can be simplified for
o € {—, +} as an equality
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1
Y§Dp =059 + Ky (3.56)

in L? (T") with K as given in (3.34).

Proof. Let ¢ € CplW (I") be arbitrary. Corollary 3.3.9 implies the continuity of
the operators K : C\, (') — L*(T) and K’ : C,\,(I') — L*(T). From this
we have K¢ € L?(T). As the set of non-smooth points x € I' has zero mea-

sure, these have no effect on the equality in L? (I') and the assertion follows from
Theorem 3.3.13. O

In the next theorem we will present the conormal trace of the single layer
potential.

Theorem 3.3.15. Let " € szw and ¢ € CplW (T"). Then we have for o € {—, +}

1
Yy Se = —(aigo—K’tp) a.e.onT (3.57)

with K’ as given in (3.34).

The jump relation (3.57) is first proven at smooth surface points X, similarly to
Theorem 3.3.13. Furthermore, the difference n (y) — n (x) has to be estimated in
a neighborhood of x. Details can be found in [102, Theorem 21] and will not be
presented here.

3.3.4 Explicit Representation of the Boundary Integral
Operator W

We will now turn our attention to the operator W. We have already shown in
Theorem 3.3.1 that [y; D] = 0 holds. This statement, however, does not contain
any explicit representation of the boundary integral operator W. We will note in
advance that the integral over the function y;xy1,yG (X —y) ¢ (y) in general does
not exist as an improper integral over I' x I" and therefore the differentiation can-
not be interchanged with the integration (see Remark 4.1.35). There do, however,
exist different representations of the trace y; D as an improper integral. Here we
choose the representation by means of integration by parts, which possesses favor-
able stability properties with respect to numerical discretization and is due to [159],
[171] and [136]. Alternatively, one can also define the integral for the function
Y1xV1yG (X —¥) ¢ (y) by means of a generalized form of integration (Cauchy prin-
cipal value, part-fini integral). We will deal with the Cauchy principal value in
Sect. 5.1.2. For an approach via hypersingular or part-fini integrals we refer to [201]
and [211].

In this section we will use elementary properties of Fourier analysis that are
provenin, e.g., [243].
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For ¢ € H'/2(I") the double layer potential D¢ is defined by (3.5) or Defini-
tion 3.1.5. We set
X = {D<p g e HY? (F)}

and recall the relations
Wl=¢, [yiul=0 and L (u|lg-yq+)=0 onQ UQT (3.58)

forallu = Dy € X and L as in (3.1). We set L? (R3) = (L2 (R3))3. As the
matrix A is positive definite, another positive definite matrix A/2 can be uniquely
defined by AV2A1Y2 = A The function u is, in general, discontinuous across I' so
that the gradient Vu cannot be defined in the classical sense, but instead has to be
interpreted as a distribution. The “function part” g € L2 (R3) of AY/2Vuy is defined
by

glao 1= A2V u|qe o€{—+} (3.59)

onQ-UQT.

Lemma 3.3.16. Let g be as in (3.59) and let the coefficients in L be denoted, as in
(3.1), by A, b and c. Then

div (Al/zg) — 2<A—‘/2b, g> —eu=0

in the sense of distributions on Cg° (R3).

Proof. The jump relations (3.58), the definition of the weak derivative and integra-
tion by parts on the subdomains Q~, Q2 together give us for all w € C{° (R3)

div (A1/2g> (W) = —/R3 <A1/2g,Vw>dX= —/Q N <A1/2g, Vw>dx
v

:/ div (A1/2g> wdx—i—/ [yiu] wds
Q-uQt r

= /Qiugﬁ ((—Lu) + 2<A_1/2b,g> + cu) wdXx.

O

In the following lemma we will be using the surface distribution ér, which is
defined by

vér (w) := /1" (v, W) (X) dsx (3.60)

for sufficiently smooth test functions v, w.
Lemma 3.3.17. Letu = Dy € X and g be as in (3.59). Then

AYV2Vy — g = gAY ?nép

in the sense of distributions on C3° (R3).
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Proof. For w € C§° (]RB) we have

(AI/ZVu> (w) = —/R3udiv (Al/zw) dx = /smm <A1/2Vu,w>dx

+ / ¢<A1/2n, w>ds :/ (g, W) dx + A ?nsr (w).
r Q-uqt

O

Therefore we have derived the system of equations

div (A'/2g) —2(A"1/2b,g) —cu =0 G
A2V — g = gAV 20y '

for the functions u, g.
Case I1: ¢ # 0.

Elimination of u in the first equation gives us, with the abbreviation VT := div,
1
Lg:= - (AV2VVTAl/2g - 2A12VBTA™ 2g) — g = oA Pmsr.  (3.62)
c
We set

¥ = —cGI —curla,—op curla o (GI) (3.63)

with
curly y w := (AI/ZV + A_l/zv) X W

and the fundamental solution G from (3.3). The application of the differential
operator curly v to a matrix is defined columnwise:

Yw = —cGw—curly, sy curly o (GW).

Lemma 3.3.18. Let ¢ # 0. The function X in (3.63) is a fundamental solution of
the operator L in (3.62), i.e.,
LY =L (3.64)

Proof. The Fourier transform of equation (3.64) combined with the substitutions
¢ := AY2g and b := A~1/2b gives us

1 2i -~ A
(——ZCT — 2T - I) X=L (3.65)
c c
If we insert the Fourier transform of X

— (i¢—2b) x (i;

—cl
IC|? + 2ibTE + ¢

I

5 - L
IZII” + 2ibT¢ + ¢

) (3.66)

into (3.65) and use the statement of Exercise 3.3.19 we obtain the assertion. O
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Exercise 3.3.19. Show that the function S in (3.66) satisfies (3.65).

By means of a fundamental solution X, the solution of (3.62) can be written as a
convolution
g =3 & (¢A1/2n8r> . (3.67)

Case 2: ¢ = 0.

We eliminate the function u# from the second equation in (3.61) by applying the
operator curly  and by then using curly o (A'/2 gradu) = 0. This gives us

—curly o g = curly o ((pAl/2n8r) . (3.68)

Applying the operator A/2V to the first equation (3.61) (with ¢ = 0) and using the
relation
A2y (div Al/zg) =div(AV) g+ curlygcurlyog

gives us the equation
div (AV) g + curly g curly o g — 2A1/2V <A—1/ 2p, g> —0.  (3.69)
Elementary tensor algebra then results in the two relations:
curly g curly g g = curla,_op curla o g+2(A‘1/2b) xcurlao g
(3.70)
2 (A7Y2b) x curly 0 g — 2AY/2V (A71/2p,g) = =2 (b, V) g.
By combining (3.68)—(3.70) we obtain
div(AV)g—2(b, V) g = curly o curly ¢ (pndr) .
The solution of this equation is
g = — (GI) « curly,_op curls o (pndr) .
As differential operators commute with convolutions, we have
g = —curla,—op curly o (GI) * (¢ndr) .
This means that the representations (3.63) and (3.67) remain valid for ¢ = 0 as well.

Elementary properties of convolutions (see, e.g., [243, Chap. VI.3]) combined
with (3.60) yield



136 3 Elliptic Boundary Integral Equations
g(x) = ((pA1/2n8r . z) (x) = [ 0 (¥) <A1/2ny, S (x—y) > dsy. (371
r

Since in (3.58) we set u = D¢ € X for an arbitrary ¢ € H'/2(I"). We use
the relation (3.59) between g and A!/2Vu and note the continuity of (A/?ny, g (x))
over I' [see (3.58)]. Then we have for all v € H'/2(I")

/F (yiu) Yds = /F (An, Vi) yrds = /F <A1/2nx,g(x)>1//(x) ds, (3.72)
:/r/r(p(y)w(x)(Al/zny,z(x—y)Al/an>dsydsx. (3.73)

The definition of the function ¥ in (3.63) is somewhat unwieldy. We will therefore
simplify the integrand in (3.73) somewhat in the next step. The first summand of ¥
in (3.63) is the motivation behind the definition of the integral

I == —c /F /F G-y MV @ (A 0, A n)dsyds,.  (374)
Hence the right-hand side in (3.73) is equal to I; + I, with
I, = [F <— curly,—op curly o GI % (goAl/anp) , 1//A1/2n> ds.
Since differentiation and convolutions commute, we have

I, = —[ <curlA,_2b GI * (CurlA,o ((pAl/anr)) ,WA1/2n> ds
r

=— (curlA,_Zb GI * (curlA,o (¢A1/2n8p))) (1//A1/2n5p) .

Lemma 3.3.20. The integral I, has the representation

I, = <GI * (curlA,o (¢A1/2n8p)) ,curla op (1/fA1/2n8r)>.

Proof. Letv € R3, q := GIx(curly o (pA/?nér)) and w := yA'/2ndr. It follows
from Parseval’s equation that

1 —
(curla,y (q), W)Lz(Rs) = W (CUFIA,v (@), W)
1

T @n)?

L2(R?)

/]R3 <(A1/2i§ + A—l/2v) x q (&) 7§(§)>d57

where (-,-) is defined without complex conjugation. Elementary tensor algebra
gives us
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1
(curla,y (q) ,W)LZ(R3) = W /11&3 <q &), (Al/zig — A—1/2v) X W (E)) dé&

= (q, curla,—y (W))LZ(R3) ,

from which we have the assertion. O

Finally, we will apply curly vy to the distribution Y A/2ngr. For this we define,
for A € H'/?(I'), the boundary differential operator

curlppy A := (Al/2 grad A* + AA_I/ZV) x Al/2p, (3.75)

where A* 1= Z_A € H!(Q7) denotes the trace extension of A in Q= (see
Remark 2.6.12).

Lemma 3.3.21. Let A € HY/2(T). Then
curly (AAI/Znsp) = (curlpay A) 81

in the sense of distributions on C3° (R3).

Proof. Letw € C3° (IR3). Then

(curlA,v (AA1/2n8r>) (w) = fF <)LA1/2n, curla, —y w> ds

= / <n, AA1/2 curly —y w> ds. (3.76)
T

Let A* := Z_A. One can easily verify that div (Al/2 curla o ()) = 0. Thus with
Gauss’ theorem we obtain

/ <n, A2 curly o (Aw)>ds = / div <A1/2 curly ¢ (A*w)) dx=0. (3.77)
I -
On the other hand, elementary tensor algebra gives us

A2 curly o (A*w) = Al/2 ((Al/2 gradk*) X W+ A* curly 9 w) ) (3.78)

By combining (3.76)—(3.78) we obtain
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curla v ()LAI/ZHSF) (w) = [ <n, AAL/2 curly o w> - <A1/2n, A (A_l/zv) X w> ds
r
= _/ <A1/2n, (A1/2 gradk*) X w>
r
+ (Al/zn, A (A_1/2V> X w> ds

= [F<(A1/2 grad ™ + /\A_l/zv) x Al/2n, w> ds.

We have thus derived the following representation of /5

I =— G (x —y) {curlr a0 ¢ (X) , curlp s on ¥ (y)) dsxdsy.
I'xIl

If we combine the previous representations we obtain the proof of the following
theorem.

Theorem 3.3.22. Let ¢, € H'/2 (') and u = Dg. Then

bw (9. ) 1= [

I'x

FG (x —y) (curlp,a0 ¥ (x) , curlp s 2n ¢ (y)) dsxdsy
v 6x-9TEem{A w0 AV ) dsds,
I'xI"
— - / () Fds.
I

Remark 3.3.23. As yiu = y1 Do = —We, we have the representation

bw (9. ¥) = Wo. V) 2y Yo,y € HY/2(I).

Corollary 3.3.24. For the Laplace operator “—A”, the bilinear form by is explic-
itly given by

by (0. 0) = [ {curlr ¢ (y) , curlr ¢ (X))dsxdsy,

I'xT 4 |Ix =yl

where
curlp A :=gradA* xn and A*:=Z_A\

For the Helmholtz operator “—A — k27, we obtain

eiklx—yl

bw (9. = [

rxr 47 [[x — ||
—k? (n(x).n(y) ¢ (v) ¥ (X)) dsxdsy.

{{curlr ¢ (y) , curlr ¥ (x))
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The implementation of the Galerkin discretization of boundary integral equa-
tions requires the transformation of the operator (yo grad Z_u) in (3.75) to two-
dimensional parameter domains. The following remark provides us with the relevant
transformation formula (see [170, Chap. 2]).

Exercise 3.3.25. Let t C T be a panel which is transformed back to a two-
dimensional parameter domain © C R? by means of a C'-diffeomorphism y. :
T — 1. Letu : © — K be a sufficiently smooth function and let u : t — K be
defined by lifting, i.e., u := it o 7. Then we have

(yo grad Z_u) o xr = J.G;'Vi, (3.79)

where V denotes the gradient with respect to the parameter variables, J, : T —
R3*2 denotes the Jacobian of the transformation x. and G = J1J; € R>*2 is the
Gram matrix.

3.4 Integral Equations for Elliptic Boundary
Value Problems

In Sect. 2.9 we formulated elliptic boundary value problems as variational problems.
These problems can be transformed into integral equations, which are derived in this
chapter.

We will present two methods with which one can formulate elliptic boundary
value problems as boundary integral equations. The indirect method uses an ansatz
consisting of potentials. The unknown density functions are then determined by the
given boundary data. The direct method uses an ansatz where the given boundary
data is inserted into Green’s representation formula, which in turn is solved for the
unknown boundary data. Formulating elliptic boundary value problems as integral
equations is very advantageous from a numerical point of view if the right-hand side
in the differential equation equals zero. Therefore we will always assume, unless
explicitly stated otherwise, that the right-hand sides f in (2.129)—(2.137) are all
equal to zero. All formulations can be modified by adding Newton potentials N f
should the source term f not be equal to zero.

The sesquilinear forms associated with the operators V, K4, K_, K:L, K, W
[see (3.6)] are, for o € {—, +}, given by

by : HTY/2 () x H7V2(T) - C by (9.¥) := (V. ¥) 12

bg : HY2(T)x H7Y2(T) > C  b% (0. %) := 0% (0. V)21 + bk (9. %)
b%, : HTY/2 () x HY2(T) - C b%, (9, w) := 03 (0. ¥) 2(r) + bxr (0. %)
bw : HY2(T)x HY2(T) > C  bw (0. %) := W, V)12
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with
bk (¢, ¥) == (K@, V) 2(ry and b (¢, ¥) == (K'0, ¥) 121

[see (3.34)], where (-,-);2(r) again denotes the extension of the L2 (T) inner
product to H'/2(I") x H='/2(T") or H~'/2(I") x HY2(T"). If the sesquilinear
form — as in the case of b?(, b?(, — contains one summand which is of the form
+1/2 (u, ¢)2(r) it is called an integral operator of the second kind. Otherwise, it is
called — in the case by and by — an operator of the first kind. The associated integral
equations are appropriately called equations of the first and the second kind.

3.4.1 The Indirect Method

For functions ¢ € H~/2(T") and ¢ € H'/? (") we can define the potentials

u_ =S¢ on 27, w_:= Dy on 27,
+ + (3.80)
uy = So on T, wi = Dy on Q7.
The principle of the indirect method consists in first determining the unknown den-
sity function ¢ as a solution of a boundary integral equation by means of the given
boundary conditions. Then we can insert it into the associated potentials, which
gives us the solution of the boundary value problem. The following proposition
recalls the properties of the potentials u+ and w4.

Proposition 3.4.1. The functions uy, wi from (3.80) satisfy

l.u_e H (Q7) and Lu_=0inQ~,
2. uy € Hl(l)C (Q+) and Luy =0inQ,
3.w_e H'(Q7) and Lw_=0inQ7,

4. wy € Hl(l)C (Q+) and Lwy =0in Q™.

We will formulate the integral equations for the boundary value problems given
in Sect.2.9. The formulation as an integral equation is by no means unique. The
single layer potential can just as well be used as the double layer potential.

3.4.1.1 Interior Problems

IDP:

Single Layer Potential: Let gp € H'/2 (I") be given. Find ¢ € H~'/2(I") such
that
by (p.) = (gp. M2y Yne H V(D).

Double Layer Potential: Let gp € H'/2(I") be given. Find ¥ € H'/2 (T") such
that
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1
=5 Wiawy + bk Wom) = (€. Miaey  Yn€HTVAIT). (38D

INP:

Single Layer Potential: Let gy € H~'/2(I") be given. Find ¢ € H~Y/2(I")
such that

1
5 @iy + bk (@) = (v M2y Yne HY2 ().

Double Layer Potential: Let gy € H~'/2(I") be given. Find € HY?(I')
such that
bw (f.1) = —(gn. M2y Yne H2 (D).
IDNP:

In order to formulate integral equations for mixed boundary value problems, we
need to use Sobolev spaces on the Dirichlet and Neumann parts of the boundary I'.
Here we will only introduce the relevant function spaces and summarize the required
theorems. For a detailed analysis we refer to [162, p. 231 ff].

Let T'g C I' be a measurable subset of the boundary with [I'g| > 0. The Sobolev
space H® (I'y), s € [0, 1] was defined in (2.90) as

H* (To) = {ue H* (I') : supp (u) C To}. (3.82)
The norm on H* (Tp) is defined by
el s (rgy *= Hu* ||Hs(1")7 (3.83)

where u* denotes the extension of # on I" by zero. "

The spaces with negative indices are again defined as dual spaces: H* (I'y) :=
(H* (Tp)) for s € [0,1]. Conversely, we have: H ™5 (T'y) = (FI“‘ (1"0))/ fors €
[0, 1].

For the mixed boundary value problem our aim is to find the Dirichlet data on
'y where the Neumann data is given and vice-versa on I"p. This requires the local-
ization of the boundary integral operators on I'y and I'p in the range as well as the
domain. For functions ¢, ¥ on I' with supp (¢) C T'p and supp () C Ty we set

Vopy := (VQ)lr, . Kype:= (K'9)Ir,

Kpny = (KY)|r, . Wany := (WY)Ip,, .

where the operators K, K’ are given by
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1 Lo _
K=—2I+y;D=z1+y, D
2 2
1 N 1 _

and the two equalities on the right-hand side follow from (3.56) and (3.57). For suf-
ficiently smooth ¢, ¥ they have the representation (3.34). The mapping properties
of these operators are given in the following theorem.

Theorem 3.4.2. We have
Vpp : HV?(Tp) - HY?(Tp). Kyp : H/>(Tp) — H™'/2(Ty).
Kpy : H'? (Ty) — H'2 (Tp). Wyn : H'?(Ty) — H™V2(Ty).
For ¢ € H-1/2 ('p)and ¥ € H/? (') weuse, in Q°, 0 € {—, +}, the ansatz
u’ =S¢ — Dy in Q°.
If we then form the traces we obtain
you® = Vo — (%11 +K) ¥,
yiu® = (—02—11 + K’) o+ Wiy
If we consider the first integral equation on I'p and the second on I'y and if we

apply the given data (yJu?) |FD = gp and (y{u°) |FN = gn, we obtain a system
of integral equations for ¢ € H~1/2(T'p) and ¥ € HV/2 (Ty)

ol
gp = Vppy — (7101\1 + KDN) v onIp, (3.84)
ol ,
gN = —71ND +Kyp |+ Wany onIy. (3.85)

If we then combine the operators in (3.84) and (3.85) to form a 2 x 2-system of
operators we formally obtain for (¢, ¥) € H~'/2(I'p) x H'/2 (I'y) the equation

[( Vob —(o%IpN + KDN)i| (f/)) _ (gD) (3.86)

—ZInp + Kiyp) WnN v gnN

in H'Y2(Tp) X~H_1/2 (T ). If we multiply (from the right-hand side) by (1, k) €
H~'2(I'p) x H'Y2 (I'y) and integrate over I'p and I'y we obtain
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bvpp (0. n) —bgpy (1) + bK;VD (@, &) + bwyy (k)
= (gp.Mr2rp) + @N- K2y (3.87)

where each sesquilinear form is defined by localization analogously
byyy : HTV2(Tp) x HV2(Tp) = C by, (0.1) := VoD@ )12
bkpy : H V2 (Tp) x HY2(Ty) = C  bkpy (0. 1) == (KpN V. 1) 12(1y)

b, s H/2(Cn) x HTV2(Tp) > C by (¢9.6) = (Kjp ¥, €) 12

bwyy : HYV2(Cn) x HYV2(Tn) = C  bwyy ($k) = (WNN V. K) 21y -

Note that the contribution of the identity operators I py and Iyp in (3.86) vanishes,
as I'y and I'p have a disjoint interior. We obtain a more compact representation if
we use the left-hand side of (3.87) to define the sesquilinear form b,,;,.; on H x H,
with

H:= H 2(Tp)x HY>(Ty). (3.88)

The direct method for the interior mixed problem as an integral equation then
reads:

In (2.144) and (2.145) let f = O and (gp.gn) € H'/?> (T'p) x H~Y/2 (') be
given. Find (¢, ¥) € H such that

bmixed ((:Z) <:)> = (gp.-Mr2rp) T (&N K)2ry) ¥ (n,k) € H. (3.89)

Remark 3.4.3. Mixed boundary value problems are usually only continuous and
regular for a small range of Sobolev indices. The operator on the left-hand side
of (3.86) maps H™Y/2+S (Tp) x HY2+s (Ty) to HY2s (Tp) x H™1/2+5 (T'y)
continuously for all |s| < so (') < 1/2. We have:

(a) so = 1/4 for general Lipschitz domains.
(b) 1/4 < so < 1/2 for Lipschitz polyhedra (see Definition 3.2.1) and also for
globally smooth domains.

The range of regularity for the mixed boundary value problem is smaller com-
pared to the range of regularity for the pure Dirichlet and Neumann problems (see
Theorem 3.2.2 and 3.2.3). Essentially, these theorems can be applied to the present
case; however, the range of regularity is given by |s| < so where sg is defined as in
(a) and (b).
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3.4.1.2 Exterior Problems

EDP:

Single Layer Potential: Let gp € H'/? (I') be given. Find ¢ € H~'/2(I") such
that
by (p.m) = (€p. W2y  Yne HV2(D).

Double Layer Potential: Let gp € H'/?(I") be given. Find € H'/? (") such
that

1 -
5 WMy + bk 0 = (gp. W2y Yne HV2 (D).

ENP:

Single Layer Potential: Let gy € H~'/2(I") be given. Find ¢ € H~'/2(I")
such that

1
—3 (@, M2y + bk (9. M) = (N, M L2 Ve HV?(T).

Double Layer Potential: Let gy € H~'/2(I") be given. Find v € H'?(I)
such that
bw (y.n) = —(gn- M2y Ve HY2 (D).
EDNP:

In (2.155) and (2.156) let f = 0 and (gp.gn) € HY2 (I'p) x H™/2(I'y) be
given. Then the associated formulation by integral equations for the indirect method
reads: Find (¢, ¥) € H such that

buixed ((f;) (Z)) = (@D .- Mr2wpy)+@N.2ryy YV (n.k) € H (3.90)

3.4.1.3 Transmission Problem
For g € H™Y/2(T") and ¢ € H'/?(T") we use the ansatz
u=Se+Dy inQ UQT

and note that Lu = 0in Q~ U Q. The jump relations from Theorem 3.3.1 give us
the two relations

gp = [Dy] =, gn = [y1S¢] = —¢.

This means that we can formulate the solution to the TP explicitly:
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u=—-Sgny + Dgp inQ UQT.

With this we have given formulations by integral equations for all boundary
value problems for the indirect method. Once the unknown density functions have
been determined they have to be inserted into the associated single or double layer
potentials, which results in a function u that satisfies the boundary conditions and
the equation Lu = 0 in the appropriate domain. We will discuss existence and
uniqueness theorems for these integral equations in Sect. 3.5.

3.4.2 The Direct Method

The direct method is based on Green’s formulas (Theorem 3.1.6). In general, we
will again assume that the differential equation is homogeneous, i.e., that we always
have f = 0in Q. In the event that f 7% 0 we can use the Newton potential to revert
to the case f = O [see (1.22) and Theorem 3.1.6].

3.4.2.1 Interior Problems

We shall again begin with interior problems. The extension of a function u €
Hi (27) to QT by zero will again be denoted by u and satisfies u € Hi (Rd).
Thereby, Green’s representation formula (3.10) becomes applicable and gives us

u=S(y;u)—D (you) inQ~. (3.91)

This means that the function u in Q7 is determined as soon as the boundary values
Yo U or, as is necessary, the values of the conormal derivative y; u are known. By
applying y, or y; to (3.91) we obtain two boundary integral equations, i.e., a rela-
tion between the Dirichlet and Neumann data. We set up := yguand uy := y;u
and obtain

1
up = VMN— (K_EI)MD
| (3.92)
UN = (K/ + 51) uy + Wup.

By means of these two equations, the interior problem can be transformed into one
boundary integral equation of the first kind and another of the second kind.

IDP:

Equation of the first kind: Let gp € H'2 (I") be given. Find uy € H~/2(T)
such that

1 _
by (un,@) = 5 (2D, @)r2m) + bk (gp.9) Yo e H Y2(T).
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Equation of the second kind: Let gp € H 1/2 (I") be given. Finduy € H™1/2 ()
such that

1
5 N @) 2y = bxr (un. @) = bw (¢p.9) Vo € H'2(T).
INP:

Equation of the first kind: Let gy € H~2 (T') be given. Find up € H/2 ()
such that

1
bw (up,¢) = 5 (en.@)r2) — b (gn.¢) Vo € H2(I).

Equation of the second kind: Let gy € H~'Y2(I') be given. Find up €
H'/2 (") such that

1 -
5 D912y + bk (up. @) = by (gn9) Vg€ HTV2 (D).

IDNP:

For the mixed boundary value problem we use the first equation in (3.92) on I'p
and the second equation on I'y . In so doing, we obtain the 2 x 2 system of boundary
integral equations

|:VDD —KDN](MN) _ |: —Vbn %1+KDD](gN)
Kyp Wnnw up 11— Ky —Wap gD
If we then multiply by (¢, ¥) € H and integrate over the respective surface parts

I'p and I'y we obtain the variational formulation: Find (ux,up) € H [cf. (3.88)]
such that

1
Bmixed ((ZZ) (:;)) =3 {(gD. 9 r2rp) + (€N V) 200}

prhs EN ’ ¢
+ mixed ((gD) <w

b, ((g”), (“’)) 1= by, (§8-9) + bk pp (§0.9) —bicy, (8N V)

gp) \¥
~bwyp (€D, V) - (3.93)

for all (¢, ¥) € H with
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Remark 3.4.3, which concerns the mapping and regularity properties of the
integral operators of the indirect method as applied to the mixed boundary value
problem, also holds for the direct method.

3.4.2.2 Exterior Problems

Green’s representation formula as given in (3.19) was proven for exterior problems
with an additive, L-harmonic extra term. However, with Theorems 3.1.11, 3.1.12
and 3.1.13, we know that, for the Laplace and Helmholtz problems as well as for
the positive definite case aminc > ||b||, this extra term vanishes and that Green’s
representation formula holds unchanged. In this section we will assume that there
exists a subspace V' C H,\, (RY\T') such that, for all u € V with Lu = 0 in
Q* U Q7 the representation

u = —S8 [y1u] + D [you] inQ - uUQt (3.94)

and the trace theorems for yy and y; in V' all remain valid unchanged. We setu™ = 0
on 27 and only consider (3.94) in the exterior space

ut =-Syfut + Dyjut  inQt.
If we form the traces we obtain the equations

up = —Vuy + (Kup + up), in H'/2(I),
(3.95)
uy = —(K'uy — 3un) = Wup, in H-1/2(T').

In the following we will use these results to derive the boundary integral equations,
achieving this by using the known, and solving for the unknown, boundary data.

EDP:
Equation of the first kind: Let gp € H/2 (I") be given. Find uy € H™1/2 ()

such that

1 _
by (un.¢) = =2 (¢p.9)12r) + bk (gp.9) Vg € H 2(T).

Equation of the second kind: Let gp € H 1/2 (I") be given. Find uy € H™1/2 ()
such that

Y2y + bk un¥) = ~bw (gp.¥) Yy € HY2 (D).
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ENP:

Equation of the second kind: Let gy € H™
H'2(T") such that

1/2(T") be given. Find up €

1
bw (up,¥) = =3 (&N ¥)r2ry —bxr (an.¥) VY € H'Y2().

Equation of the second kind: Let gy € H~'/2(T) be given. Find up €
H'/2(T") such that

1
3 (up, @) p2ry — bk (up,9) = —by (gn, ¢) Voe HT'/2(). (3.96)

EDNP:

Let gy € H™'/2(Ty) and gp € H'/?(Tw) be given. Find up € H'/? (Ty)
anduy € H~'/2(I'p) such that

1
binixed ((ZZ) (:Z)) =3 {(gp.©)r2rp) + (&N V) 2(0p) )

brhs 8N ’ ¢
+ mixed ((gD) (w))

for all (¢, ¥) € H, where b,;x.q and prhs , are defined as in (3.90) and (3.93).

mixe

3.4.3 Comparison Between Direct and Indirect Method

It is either the integral operators V, W, &1 + K and £1+ K’ or their localizations on
the boundary parts I'p and I'y that appear in the direct and indirect formulations.
This raises the question which of the two formulations is more suited to concrete
applications. In the following we will discuss some of the merits and drawbacks of
the direct and indirect formulations:

1. The right-hand side of the integral equation for the direct formulation is defined
by an integral operator [see, e.g., (3.96)]. In contrast, in order to generate the
right-hand side of the indirect formulation one simply needs to evaluate the
L? (T) inner product of the boundary data and the test functions.

2. When one solves the direct formulation one obtains the Dirichlet and Neumann
boundary data explicitly. However, solving the indirect formulation only pro-
duces an abstract auxiliary function that subsequently has to be evaluated by
means of potentials.

3. The solution of the underlying differential equation in the interior is defined as
a representation formula in both cases. For the indirect formulation an integral
over the boundary I' has to be evaluated for every point of the domain [see, e.g.,
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(3.4)], while the direct formulation requires the evaluation of two integrals over
I" [see, e.g., Theorem 3.1.6 (with f = 0)].

4. For non-smooth surfaces the solutions of the integral equations contain charac-
teristic singularities at the vertices and edges of the surfaces, [237]. With the
direct method the solutions are exactly the Cauchy data of the underlying bound-
ary value problem. Therefore the singularities of the solutions of the boundary
integral equations with the direct method are exactly the Cauchy data of the
singularities of the solutions of the boundary value problem. With the indirect
method, however, the solutions of the boundary integral equations are jumps of
the Cauchy data of the interior as well as the exterior problem. On non-smooth
surfaces the solutions of the boundary integral equations, obtained by the indirect
method, contain traces of the singularities of solutions of the interior and exterior
problem, which may in turn reduce the regularity considerably: If 27 is a convex
polyhedron the solutions of the Dirichlet problem for the Laplace equation are in
H?(Q7™) within Q. However, the solutions of the associated exterior problem
are, in general, only in H{ (Q%) with s < 2 because of the reentering vertices
and edges within Q7.

These comparisons only give us a rough indication as to which of the two for-
mulations is more suited to practical applications. Note that, in principle, solving
the integral equations has the same complexity for both formulations, since in both
cases the same operators appear. We will consider two typical applications:

1. If the purpose is simply to determine the unknown boundary data then the direct
formulation is more suitable than the indirect formulation.

2. For applications in which the solution of the underlying differential equation has
to be evaluated in many points of the domain, the indirect formulation is more
suitable.

3.5 Unique Solvability of the Boundary Integral Equations

In this section we will show the coercivity of the integral operators V' and W under
suitable conditions. Combined with the injectivity of the boundary integral opera-
tor we can then deduce the unique solvability of the variational boundary integral
equation of the first kind.

3.5.1 Existence and Uniqueness for Closed Surfaces
and Dirichlet or Neumann Boundary Conditions

First we will consider closed surfaces I' = 92~ and the case that either Dirichlet
or Neumann boundary conditions are prescribed on all of T".

We begin with the ellipticity of V' and W in the case of the Laplace operator.
For this, we will need to generalize Green’s formula (2.110) for functions with
unbounded support.
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Lemma 3.5.1. Let aminc > ||[b|> ord = 3 and L = —A. For all ¢,V €
H~Y2(T) with u := So)lg+, vi= (S¥)|q+ we have

WTMWWH¢)=—Bm%%W- (3.97)

Proof. We will first consider the case L = —A andd = 3.Leta > 0 with Q~ C K,
and

x—y| >1.
(x, y)eI‘XBBa ” y”

We apply Green’s formula (2.110) for the bounded domain €, := Q% N B, and
obtain

(y1u, yov) L2(ry + (Y1, vov) L2,y = —Ba, (4, V) (3.98)

with I'; = dB,. The normal vectors on I" point, as usual, in the direction of Qt
and those on I'y in the direction of €2,. With this we have

ou
‘/I;a %vdsy

/ 1G %= 172t

a

= ||§0||H—1/2(r) ||1/f||H—1/2(I~)

d
‘—G(x—-)H dsy.
on H1/2(T)

It follows from (3.21) for x € I', that

G x=Igi2qy < CIGX=)g1r) < Ca™!

oo

G@—ﬂ‘ Ca™>.

H1/2(I‘) ‘ Hl(l")

With |T;| < Ca? we obtain

ou
/Fa a—nvalsy

Therefore, in (3.98), we can let a — oo where the second term on the left-hand side
goes to zero. This proves the assertion for L = —A.

Now let aminc > ||b||>. Lemma 3.1.9 shows that, in this case, the potentials
exhibit an exponential decay so that the same arguments as in the previous case can
be used to prove the statement. O

< Ca ' @lg-12a 1V z-1/2(r) -

Exercise 3.5.2. Let apinc > ||b||2 ord =3and L = —A. Forall o,y € H1/2 ()
withu := (D@)|g+, v := (DY)|q+ we have

(vitu., VOV)L2(F) = —Bgq+ (u,v).
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Theorem 3.5.3. Let d = 3 and L = —A. Then the associated sesquilinear forms
by : HYV2(T)x H'Y2(T') - C and by : H'2 (') /K x HY?(I") /K are
elliptic:

by (0.9) = cv @l f-1oy Vo€ HTV/2(D),

bw (. ¥) = ew ¥ 5120k Yo € HY? (D) /K.

Proof. We begin with the sesquilinear form by . For ¢ € H~'/2 (") we set u = S¢.
It follows from (3.24) that u € H'! (L, Rd). The jump relations give us

[yiu] = —pin HY?(') and [u] =0in H'2(T). (3.99)

Green'’s representation formulas (2.110) and (3.97) give us, because of Lu = 0 in
Q- uQt,
(Vl_u’ y()_u)LZ(l") = B_ (u’ u) 5
+ + —_B
(7/1 U, Yo "‘)LZ(F) = + (u,u).
By subtracting the first equation from the second and by using [u] = O we obtain,
Wlth 397UQ+ = B_ + B+,

([r1u] , yow) 12(ry = —Bg-uq+ (U, u) .

Combining (3.99) with the H! (L, R¥)-ellipticity of B g+ [see (2.171)] gives us

by (¢, 9) = (¢, V‘/’)L2(r) = (¢, VOM)LZ(F) = Bg-uq+ (u,u) = ¢ ||”||§11(L,Rd) .

(3.100)
By Definition 2.7.6 and the fact that Lu = O on Q™ U QT, we have for the one-sided
conormal derivatives (where o € {—, +})

. (P v) 2y |Bo (u, Zao )|
vy ull g—1/2(ry = sup = sup ———r T2
YyeH1/2(IM\{0} ”w”Hl/Z(I‘) YveH1/2(IM\{0} ”w”HVz(F)

lull g1 .oy 1 Zoo ¥l g1 .oy

IA

C sup
YeH1/2(M\{0} 1V g2

Since Zgo Yy € Hclomp (R29) there exists a ball B, with supp (Zqo ) C B,. With
this and by the equivalence of the norms in H' (B,) and H' (L, B,) we obtain

1Zao Vg (r,00) = 1Zas ¥l g1 (B,nee) < C 1V a2y -

From this and with (3.100) we have the ellipticity

2 2 — 2 2
el —12my = Nyl -1y < My ulf—1nqy + v ulg-12m

C
=C ||“||§{1(L’Rd) = ?bV (¢.9).
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Next we will prove the ellipticity of the sesquilinear form by on H'/2 (I'") /K.

For € H'2(T') /K we define u := Dv. From (3.24) we have u € H' (Q7) x
H! (L, §2+). The jump relations give us

[u] = v, [y1u] = 0. (3.101)

Green’s representation formulas (2.110) and (3.97) give us, by taking into consider-
ationthat Lu =0on Q- U QT,

(7/1_“, V()_”)LZ(F) = B_ (u,u)
(V1+u7 V(T”)LZ(F) =—B4 (u,u).
If we subtract the first equation from the second and use [y;u] = 0 we obtain
(1w, [u)) p2ry = — (B= (u,u) + By (u,u)) . (3.102)

The right-hand side in (3.102) defines, as in (2.169), the sesquilinear form Bg—;q+.
By combining ¥ = [u] with (3.6) we obtain with (3.102)

bw (Y. ¥) = W W) 2y = (U], —v1W) 12(ry = Bo-uq+ (u,u).  (3.103)

The continuity and the second Poincaré inequality (Corollary 2.5.10 and
Theorem 2.10.10) give us

2 . 2
”W”Hl/z(r)/ﬂg = clgnfg (| [z2] C”HI/Z(F)

IA

2
+ . —
(H Yo MHyl/z(r) + clélﬂfx Ilyo™ (u— C)”HI/Z(F))

<2C (||u||§,l(L.Q+) + inf flu— c||2Hl(Q_))
<2 (Juf} 100+ ) = € Baur (u.u) =Chy (1. 9).

O

We now turn our attention to the ellipticity of the boundary integral operators V'
and W for the general elliptic differential equation.

Theorem 3.5.4. Let apinc > ||b||>. Then the associated sesquilinear forms by :
H™Y2(@T)x HY2(T) — C and by : H'/2 (') x HY2 (") are elliptic.

Proof. The proof is analogous to the proof of the previous theorem. We begin with
the sesquilinear form by. For ¢ € H™'/2(T') we set u = S¢. It follows from
Theorem 3.1.16 and Lemma 3.1.9 that u € H'! (Rd). As before, the jump relations
and Green’s representation formulas (2.110) and (3.97) give us

([yru], VO“)L2(F) = —Bg-uq+ (u,u).
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It follows with the H'! (]Rd)-ellipticity of Bqg—q+ and the continuity of the trace
operator that

by (¢,9) = (0. V@) 21y = (¢, You) 2(ry = Bo-ua+ (u, u)

2 2
= ”“”HI(L,Rd) = clelz-12qy -

The proof of the ellipticity of by in H'/2 (") is similar to, yet simpler than, the
proof of Theorem 3.5.3. This is due to the fact that, since the interior Neumann prob-
lem is uniquely solvable in the case aminc > ||b|%, we need not consider quotient
spaces. O

We have now shown that the integral operators V' and W are elliptic in suitable
Sobolev spaces for elliptic boundary value problems with L = —A or api,c >
|Ib||*>. Thus the unique solvability is a direct consequence of the Lax—Milgram
lemma.

Considering the general elliptic operator L in (2.98), we can prove a Garding
inequality for the integral operators V' and W and therefore the Riesz—Schauder the-
ory from Sect. 2.1.4 becomes applicable. The details can be found in the following
Proposition.

Proposition 3.5.5. Let G be the fundamental solution [see (3.3)] defined in combi-
nation with the operator L from (2.98) and let V and W be the boundary integral
operators defined thereby. These satisfy a Gdrding inequality in H='/2 (") and
H'Y2 (). More specifically, there exist compact operators Ty : H™Y/2(T) —
H'Y2(T) and Tw : H'/?(I') — H~Y2 (") such that

(V4 Tv)wwag = cv [uly-ioqy — forallue HTV2(T),  (3.104)
(W + Tw)v.v) 2y = cw V|32 forallve HYV2(T).
The proof can be found in [72]. The Géarding inequality does not yet provide

us with the existence of solutions; we still need to determine the injectivity of V
and W.

3.5.2 Existence and Uniqueness for the Mixed
Boundary Value Problem*™

Let Q= C R3? again be a bounded Lipschitz domain with boundary T' and let
I'p, 'y C T be relatively open boundary pieces with I'p N I'y = @ and

r=TpUTx. (3.105)

* This section should be read as a complement to the core material of this book.
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For simplicity’s sake, we assume that I'p and 'y are simply connected and we
recall the definition (3.82) of the relevant function spaces H* (I'g), H® (I'g) on
I'pCT.

We consider the mixed boundary value problem for the Laplace operator:

Au=0 in <, u=gp onlp, du/on =gy only (3.106)

for given boundary data gp € H'Y?(I'p), gy € H~Y?(T'y) and we refer to
Sect. 2.9.2.3 for the associated variational formulation.

A (weak) solution u € H!'(—A, Q7) can be written in terms of its Cauchy data
¢ = u|r and 0 = Jdu/dn|r according to

u(x) = (So)(x) — (Do) (x), Xxe Q™ (3.107)

(see Theorem 3.1.12).

In order to determine u, we need to determine the missing Cauchy data (u|r,,,
(0u/0n) |r,,), which can be obtained as a solution of the integral equation (3.89).

In this section we study the ~ellipticity of tEe sesquilinear form b,eq : H X
H — K from (3.89) with H = H~/2 (T'p) x H'/? (T'y). We restrict ourselves to
the Laplace problem.

For (¢,0) = (¥, n) € H we have

Bmixed ((g) , ((p )) = (Vope.9)12(rp) + (WNNO.O) 21y -

o

The following lemma deals with the ellipticity of the single layer operator as well
as the normal derivative of the double layer operator.

Lemma 3.5.6. Let @ C R3? be a bounded Lipschitz domain and let Tp, Ty be
a partition of the boundary T into simply connected pieces with positive surface
measure that satisfy (3.105). Then there exists a constant y(I'p, T'n) > 0 such that

Yo € HY2(Tp): (Vope.9)12rp) = Cv ”‘/)H%*I/Z(FD)

Yo € HI/Z(FN) : (WNNO, O)LZ(FN) >y ||O||§_:”/2(FN) .

Proof. For the first estimate we use ¢ € H™Y2(T'p) = ¢* € H~Y2(T") with
the zero extension ¢* of ¢ on T'. It follows from (3.83) that ”‘/’”I-II—I/Z(FD) =
l¢o* |l r—1/2(ry and the ellipticity of V on I" (see Theorem 3.5.3) gives us

(Vppo, ¢)L2(FD) = (VQO*, ¢*)L2(1—~) > CV||§0*||§{—1/2(I~) = CV||¢”§§—1/2(FD) .
(3.108)
The estimate for the operator W follows from

o€ H/*(Ty) = o* € H'/*(I), loll g12yy = o™ Na12ry -
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From this and from the ellipticity of the hypersingular operator W on I' (see
Theorem 3.5.3) it follows that

(WNNO', O)LZ(FN) = (WU*7 U*)LZ(F) = CW”O—*”§11/2(F)/K

— : * 2
=cw {21]1% lo —c||H1/2(F). (3.109)
We recall the definition of the H '/?(T")-norm
101217200 = 191220 + 101217200 -
lo(x) — o(y)I?
el = / / T S dsydsy. (3.110)
Therefore we have |c|g1/2(r) = 0 and thus
||O ||H1/2(1")/]K |O |H1/2(F) + mln ”0 C”iz(p) .
The minimum is attained for the mean value ¢ := |T'|™! Jpords = |T|~! fFN ods.
This leads to |¢|? < |F|_2|FN|||0||22(FN) and

min |Jo* — «|? = |lo]? c|l? —2/ ocds
eR ” ”LZ(F) ” ||L2(FN) + ” ||L2(1") 'y

— o laqeyy + IVl =26 [ ods

Iy

1 2 9 2
= |o|? +—(/ Uds) ——(/ Uds)
2@y e \Ur, 7] \Ury
1 2 ITw|
_ 2 2
= otz = ([, 700) 21tk (1)

Therefore we have the following estimate for all o € H'/2(T'y):

10121205 = (1= S8) (00" 2oy + 10" 112y )
— Tl *[|2 _
= (1= 5 107122y = (1= T N0 12 o -
(3.111)
This proves part 2 of the assertion. O

From (3.108) and (3.109) we have the ellipticity of beq:

Corollary 3.5.7. For |T'y| < |U'| there exists a constant ¢ > 0 such that for all
(p.0) € HV2(T'p) x HY2(T'y) we have
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% 2
i ((£)(£)) 2 ¢ (0o + 101y G112

Theorem 3.5.8. The systems of boundary integral equations (3.89) and (3.86) asso-
ciated with the mixed boundary value problem have a unique solution (¢,0) € H
forall gp € HY?>(Tp) and gy € H™Y/?(Ty).

The variational problem (2.144), (2.145) associated with the mixed boundary
value problem (3.106) also has a unique solution u € Hé (27). This solution can
be written as in (3.107).

Proof. The unique solvability of the boundary integral equations follows from the
H-ellipticity of the bilinear form b,,;,.4 and the Lax—Milgram lemma.

The unique solvability of the variational problem (2.144), (2.145) associated with
the mixed boundary value problem (3.106) follows from Theorem 2.10.6.

The representation formula was proven in Theorem 3.1.12. O

3.5.3 Screen Problems™

The boundary value problems that we have considered so far always lead to integral
equations on closed surfaces. The computation of electric fields and potentials or of
stress fields near cracks often requires the solution of screen problems. Here fields
are induced by thin charged plates or screens. Screens are modelled as hypersurfaces
'y € R3 which, in general, are not closed surfaces, i.e., d[g # 0. The potential
equation is formulated on the exterior R3\I'g and the boundary integral equations
reduce the problem to the screen I'y.

The energy spaces for integral equations on boundary pieces were given by
H1/2 (I'p) and HY 2(T'y). These spaces allow us to consider boundary integral
equations on open surface pieces I as well.

Therefore, in this subsection we assume that an open surface piece 'y is given,
which can be extended to a closed Lipschitz surface I" in R3 so that

[ =ToUT¢, (3.113)

where I'f = T \FO. In order to avoid technical difficulties we assume, as in the
previous subsection, that both I'g and I'§ be simply connected.

Dirichlet Screen Problem: Find, for a given gp € H Y 2(1"0), the function u €
H]. (R3\Tp) such that

Au=0 inR Ty, u=gponTly, |u(®)|=0 (||x||—‘) for [|x]| = oo.
(3.114)

Neumann Screen Problem: Find, for a given gy € H ~1/2(Ty), the function
u € H! (R*\T'p) such that

* This section should be read as a complement to the core material of this book.
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Au=0 inR*\Ty, du/dn= gy on Ty u(x)| = O (||x||_1) for [|x]| = oo.
(3.115)
By using the ansatz via potentials, these screen problems can be transformed into
boundary integral equations and we again formulate these as variational problems.

Dirichlet Screen Problem: Find, for a given gp € H 1/2(Ty), the function ¢ €
H~'/2(I) such that

Vo.M2wy) = (€D M2y ¥n€ HV2(To). (3.116)

Neumann Screen Problem: Find, for a given gn € H~Y2(Ty), the function o €
H'Y2(Ty) such that

(Wo.k)2ry) = (gn.k) Yk € HY2(T). (3.117)

Here we identify, as usual, the inner product (-, -)z2(r,) With its extension on
H'2(Ty) x H™Y2 (Ty) or on H~Y/2(I'g) x H'/2 (Ty).

Theorem 3.5.9. The operators V:H'/2(Ty) — HY*(To) and W : HY*(T'y) —
H_I/Z(Fo) are continuous and positive, that is, there exist cy and cw > 0 such that

Vo € HV2(To) : (V. 0)12(ry) = cV||<p||§;,,1/2(FO) , (3.118)

Vo e H3(To): (Wo,0) 12y = ew o] (3.119)

2~
H/2(To)

Theorem 3.5.9 is a direct consequence of Lemma 3.5.6 with I'g = I'p or 'y =
'y, while ¢y, c depend on T'y.

3.6 Calderén Projector™

The direct method results in boundary integral equations for the unknown boundary
data of the boundary value problem. In this section we will again turn our attention
to the identities (3.92) and (3.95) and derive some useful conclusions.

For o € {—, +} we define the space Y, by

Yo:={ue H} (Q7):Lu=0inQ%}.

On Y_ x Y4 Green’s representation formula is, in general, only valid in the form
(3.19) with an extra additive term.

* This section should be read as a complement to the core material of this book.
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For the operator L in (3.1) with apinc > ||b||? we have shown in Theorem 3.1.11
that the extra term in Green’s representation formula disappears for functions from
Y_xY +.

This also holds for the Laplace operator —A (see Theorem 3.1.12) on the
subspace

{ue H'(Q7): Au=0}x{ue H' (-A, Q") : Au=0}

and for the Helmholtz operator Ly := —A — k? (see Theorem 3.1.13) on the
subspace

{ue H'(Q7): Liu =0} x {ue H' (Lg. Q") : Lyu =0}
[see (2.149)].

Assumption 3.6.1. For the given differential operator L we can choose a subspace
X_ x Xy C Y- x Y4 such that the extra term in (3.19) vanishes and Green’s
representation formula holds in the form

u = —S [y1u] + D [you] inQ uQt

forallu € X_x X4, whereu € X_xX is an abbreviation for (u—,uy) € X_xXy
with the convention u|qo = Uy, 0 € {—, +}.

The direct boundary integral equations are based on the identities (3.92) and
(3.95) between the Dirichlet data up € H %(I‘ ) and the Neumann data uy €
H=3(T). Forall u € X_ x X4, we have with (up,uy) = (vo u.yyu) in the
inner domain Q™

(-2 ) ) o
YU UnN w %I+K’ UN UnN

and with (up., un) = (v u, y{ u) in the outer domain Q+:

tu u iy kK -V u
Yoty _ ("P) _ (2 Pl = p, (“D) (3.121)
yfru uyn 4 %I - K Uy UN

This is the motivation behind the definition of the Calderdn operator A on the
boundary I" by
A=kep_—p —<_KV)
= 5(P- L) = . (3.122)

W K’
Therefore the compact form of (3.120) and (3.121) reads
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(:(;u) Z—(UA—%I)(:?,M> o€ f—+}. (3.123)
i Lu

For o € {—, +} we then have

1
PGZ_(UA_§1)~

Proposition 3.6.2. The operators P, have the following properties:
(i) Py can be continuously extended to H'Y*(T') x H™Y?>(T') — HY*(T') x
H~'2(D).
(ii) Py is a projection of HY/2(I') x H™Y/2(I') — HZ

Cauchy (') where the space
HgaUChy(F) is defined as

Hepyeny(T) = {(ygu, yiu) 1 u € Xo} . (3.124)
(iii) We have
P.+P =1 and P,P_=P_P. on HY*I)x H V).

Proof. Statement (i) is a direct result of the mapping properties of the boundary
integral operator in the Calderén operator A.

We prove (ii): Let ¢ € H~Y/2(T"),y € H'*(T") be arbitrary and given. Then
the potential u = S¢ — Dy € Y_ x Y, and therefore satisfies the homogeneous
differential equation.

We use the notation u” = u|qo . If we apply the trace operators y§ , y{ to u® we
obtain

ol
y3u°=VSS¢—V3DI/f=V¢—(7+K)I/f
and .
o
yiu’ =yiSo—yi Dy = (—7I+K/)¢+W¢f,

o\ _ (vou
(5)= ()

We obtain statement (iii) via the relations

so that we have

1 1 1 1
O

Definition 3.6.3. For 0 € {—, +}, P, are the Calderdn projectors for the elliptic
system (L, v, y1) in 2°.
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Let poX = yy X— + )/JX+ and y1 X =y X- + J/1+X+. (Note that for all
standard cases we have yoX = H/2(T') and y; X = H~'/2(I").)

Proposition 3.6.4. We have the Calderén identities

KV =VK' ony1 X, WK = K'W onyoX (3.125a)
and
VW =11 —K?onyoX, WV =1I—-K?onyX. (3.125b)
Proof. The identity (P;)?> = P, on Hgauchy (I") can be written componentwise

(oK+K2+VW+;{1 —(V + KV —VK’) ) (oK—i—%I — (V) )

—(W +WK—-K'W) —(ok'—K?—WV—1I) —(@W) —(oK'—11)

By comparing the coefficients we obtain (3.125). O

Remark 3.6.5. The Calderdn identities (3.125) have different implications.

(a) Relation (3.125a) implies that V and W symmetrize the operators K and K’
respectively, more specifically, we have (KV) = KV and (WK) = WK.

(b) The operators V and W have the order 1 and —1 respectively. We have from
(3.125b) that applying the operators successively, i.e., VW and WV, defines
operators of order zero. This property can be used advantageously to precondi-
tion the linear system of equations that results from the Galerkin discretization
of the boundary integral operators V and W (see Chap.6, [217], [218] and
[67]).

3.7 Poincaré-Steklov Operator™

We consider the Dirichlet interior problem [see (2.140)]: For a given gp € H'/?
(), findu € H' (Q7) with yyu = gp on T such that

Bu,v)=0 VveH;(Q). (3.126)

In this section we assume that the Dirichlet problem has a unique solution.

Assumption 3.7.1. Problem (3.126) has, for all gp € HY? (I'p), a unique solu-
tion that depends continuously on gp:

”u”Hl(Q*) = C ”gD”Hl/Z(F) .

* This section should be read as a complement to the core material of this book.
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We will study necessary and sufficient conditions for the coefficients of the
differential operator L to satisfy Assumption 3.7.1 in Sect. 2.10.

The mapping gp — y;u, which assigns Neumann data to a solution of
the Dirichlet problem in 27, defines the Dirichlet-to-Neumann mapping. The
associated Poincaré—Steklov operator is given by

Psgp :=y u. (3.127)
For u € X_ (see Assumption 3.6.1) this mapping can also be written as
Pg ()/O_u) =y U

Clearly, Ps : H%(I‘) —~ H™2 (") is continuous. With (3.120) and (3.125) we can
write Ps explicitly as

Ps=V'(3I+K)=W+ 31+ K)V (I +K). (3.128)

The operator Ps coincides with the composition y; o T, where T denotes the
solution operator from Sect. 2.8 (for the choice A = 0) and whose existence is
guaranteed by Assumption 3.7.1.

We will now consider the Neumann interior problem [see (2.142), (2.143)]. For
agiven gy € H™V/2 (') findu € H' (™) such that

B (u,v) = (&N YoV)12() Vve HL(Q). (3.129)

In this case we also assume the existence of a unique solution.

Assumption 3.7.2. Problem (3.129) has, for all gy € H™Y2(T), a unique solu-
tion that depends continuously on gy :

lul gy < Clign llg-1/2(ry -

We will discuss necessary and sufficient conditions for the coefficients of the
differential operator L to satisfy Assumption 3.7.2 in Sect.2.10. In case that the

existence of a unique solution on H! (Q7) is not ensured (Example: L = —A), we
may consider suitable subspaces of H! (27) and H /2 (T") in order to satisfy the
assumption.

The Neumann-to-Dirichlet mapping Sp : H~/2(T") — HY2 (') foru € X_

is defined by
Sp(yyu) =you (3.130)
and is called Steklov—Poincaré operator. Assuming that W : H'/2 (T") — H~'/?

(") is bijective, we obtain the explicit representation

Sp=W'QRI-K)=V+QEI-K)W ' (31 -K). (3.131)
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Remark 3.7.3. The conditions placed on W can be reduced. Let

1
R:= 5<p—K’<p:¢€H‘”2(F)} and U:={¢€H‘/2(F):W¢€R}~

Then, under the assumption that W : U — R is bijective, (3.131) still holds.

Proposition 3.7.4. The operators Ps, Sp in (3.127), (3.130) are continuous. If the
underlying differential operator is self-adjoint, then Ps and Sp are Hermitian:
Ps = Pg and Sp = Sp.

Proof. Follows from the representations (3.128) and (3.131). O

Remark 3.7.5. Let Assumptions 3.7.1 and 3.7.2 be satisfied.
The operators Ps : HY/2(I') - H™Y2(I") and Sp : H~Y/2(I") - H'/2(I")
are invertible and satisfy

PsSp=1 on H™Y2('), SpPs=1 on H'/2(I).

3.8 Invertibility of Boundary Integral Operators
of the Second Kind*

In Sect.3.4 we have derived integral equations of the second kind in order to
solve boundary value problems. The relevant boundary integral operators % I +£K,
%I + K’ have order 0 and, in general, are not self-adjoint. Therefore it seems
logical to choose the function space L2?(I") for a variational formulation. How-
ever, the Calderdn identities (3.125) and the mapping properties of K, K’ (see
Theorem 3.1.16) demonstrate that the function spaces H*!/2(I") provide a more
natural choice for such a formulation. For the existence of solutions on non-smooth
boundaries I' this choice becomes essential.

Assumption 3.8.1. The single layer operator V. : H™Y2(I') — HY2(I) is
Hermitian, continuous and positive: there exists some cy > 0 such that

(0. Vo) 2@y = cv ||0||§1—1/2(1~) Vo e H™'/2(I). (3.132)
Combined with the boundedness of V' the expression

lollv = (o, VU)IL/ZZ(F) (3.133)

* This section should be read as a complement to the core material of this book.
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therefore constitutes a norm on A ~'/2(T") and is equivalent to the H~'/2(I")-norm.
In the same way V~': H/2(I') — H~Y2(T) is continuous, Hermitian and we
have

_ 1
ol -1 == (. V') oy < o lol3i2q Vo HYA(T).  (3.134)

Therefore ||@||y-1 defines a norm that is equivalent to [||| gr1/2(r). We can formulate
analogous definitions for the hypersingular operator W, which, for example for the
Laplace problem, is only positive on quotient spaces.

Definition 3.8.2. For the homogeneous Neumann problem
Lu=0 inQ", pu=0 ondQ~ (3.135)
the space of the traces of the solutions is given by
N = {you:ue H' (Q7) solves (3.135)}.

Remark 3.8.3. (a) The Riesz—Schauder theory (see Sect. 2.1.4) implies that N' C
H'Y2(T) is finite-dimensional.

(b) If the operator associated with the boundary value problem (3.135) is injective
we have N' = {0}.

(c) For L =—A, y; = % we have N = span{1}.

Remark 3.8.4. For o € {—, +)} the quotient spaces H°Y/2(T")/\ are given by the
classes
{u} :={u+v:vespanN}, ue H°V2(I).

These can be identified with the representatives ug = ug (1) := u + v, where v =
v (1) is chosen so that
Vv e N . (MO, V)L2(F) = 0.

Thus H°Y2(I") /N is isomorphic to
HZ2(T) = {uo (u) 1w € HOV? ()}, (3.136)

and the quotient norm HY2(T)/N is equivalent to the H®Y? (T')-norm on
ol/2
HEA(T).

Assumption 3.8.5. There exists a constant cy > 0 such that
(0. W) 2y = ew 91120y Vo € HA(D). (3.137)

In Theorem 3.5.3 we have shown that Assumptions 3.8.1 and 3.8.5 are satisfied
for the integral operators V and W associated with L = —A.
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Exercise 3.8.6. Prove that

VoeN: Wo=(AI+K)p=0.
Hint: In Sect. 3.9.2 the same statement is proven for the Helmholtz operator.

Theorem 3.8.7. Assuming that Assumptions 3.8.1 and 3.8.5 hold, we have for the
product of the constants in (3.132) and (3.137) the estimate cycw < 1/4 and for
oe{— +}

(1 —co)llully-1 < |(oK + 21)ul|,—y <cxlully-1  Yue H? (D).

(3.138)
0<CK=%+\/i_CVCW<1-

Proof. The Calderén identity (3.123) combined with (3.128) gives us

with

2 _
|GE+K)uly = (V7 (31 + K)u, (51 + K)u) oy
= (1 +K) V(31 +K) ) oy
= (Psu,u)p2qry — (Wu,u) p2(ry-

By Assumption 3.8.1, V=! : HY2(I') — H~Y2(I') has a square root: More
precisely, there exist a complete orthonormal system (e;); ¢y in L? (I') and positive
numbers (A;);en With Vle; = A;e; forall i € N. Thus the square root V=12 of
V=1 can be defined for all u € H'/2 (I") as

V_l/zu = Z All/z (Ll, ei)LZ(F) e;
ieN

and satisfies (V~'u, “)LZ(F)
rem 2.37, Corollary 2.38]).
Hence we have

= (V~12u, V_l/zu)Lz(F) (see, e.g., [162, Theo-

_ (-1 _(-1/2 -1/2
(Psuw)2ry = (V™' VPsuu) ooy = (V2 VPsu, v ”)Lz(r)

_1 _1
< \V72VPsulp2yIIV " 2ul 21
= [|[VPsully—1 [lully—
= (51 + K)uf s lully-1.

For u € HJ{,/Z(F) we have by Assumption 3.8.5 with (3.134)

Wu,u)r2ry = cw ||M||§11/z(p) > cwey (V_IM’M)LZ(F) = cyew |ull3_.
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It follows for all u € H 1/2(1") that

|GT+ K)ulyoy < | BT+ K)ullyy Nully—1 —cvew ul?_ .

This inequality has the form

a® <ab — cyew b2.

The case 0 = b = |lull—1 implies thatu = 0 and 0 = || (51 + K) u|;,—, = a and
therefore is trivial. For b # 0 the inequality is equivalent to

a’b2 —ab7! +cyew <0< 1—cg < % <ckx Acyew < 1/4,
from which we have (3.138) with “+”.

We prove the “—” estimate. With the inequality for “+
H\/*(T) that

29

it follows for u €

leelly—1 = ||(11 +K+ 31— K)ul,
<G =K)uly—y + [ (GT + K)ul,-
(1 —c)llully—1 < ||(31 = K)ul -

The proof for the upper bound uses (3.128):

[ = K)ulyy =Nl + |31+ K)uly o =2V (3 + K)ww) o
= ul?os + | (AT + K)ulss =2 (Psu,u) 2y
= Nl = [ (31 + K) el yms =2 (Wu, )2
< (1= —cg)?—2cvew) lully—
= cg llullf -

O

If the operator that is associated with the boundary value problem (3.135) is
injective Theorem 3.8.7 implies that the equation of the second kind

(A1 —K)p =—gp in H'*(T) (3.139)
has a unique solution for the interior Dirichlet problem
Lu=0 inQ~,  you=gpinHY?) (3.140)

by the double layer ansatz with the indirect method.
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Exercise 3.8.8. Show that for the solution ¢ of the equation of the second kind
(3.139) we have the representation

¢=—(31-K) gp=—) (31 +K)" gp. (3.141)

and that the Neumann series converges in H'/2(T).

Analogously, we have for the Neumann problem
Lu=0 inQ~, yu=gy inH/2(D)), (3.142)
the integral equation of the second kind
(A1 +K)y=gn in H7Y2(I") (3.143)
3 .

by means of the single layer ansatz of the indirect method. Formally, the solution is
given by the Neumann series

-1
V=GR ey = G -K) e G
v=0
The Neumann series (3.144) converges in the || - ||y -norm. It also converges in
H~'2(T") because the || - ||y and the | - | g—1/2(ry norms are equivalent, as the

following result, which is analogous to Theorem 3.8.7, shows.

Theorem 3.8.9. With cx € (0,1) in (3.138) we have for o € {—, +}
(1 =c)luly < [(0K =11 ul, <cxlully — Vue HG'*(T). (3145

Proof. It follows from the boundedness of %I - K HA_/I/ 2(F) — HX/I/ 2(F) and
(3.138) that for 0 € {—, +} we have

2 2 200012
< cg WVully—y = cxllully.

The left-hand inequality is proven in the same way. O

The Neumann series (3.141) and (3.144) for the representation of solutions of
the integral equations (3.139) and (3.143) motivate the representation by series for
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discretized integral equations as well. (Note that in order to evaluate (3.141) and
(3.144) one only has to apply the matrices of the discretized boundary integral oper-
ators.) However, since there already exist efficient, iterative methods for the solving
of (discretized) equations of the second kind (see Chap. 6), we do not advise the use
of Neumann series for the numerical solution of integral equations.

The algorithmic realization of equations of the second kind in H*1/2 (I} is tech-
nically involved, as the discretization is based on the H*!/2 inner-product. We will
therefore provide criteria in the remainder of this section, which permit the formu-
lation of equations of the second kind in L2 (T"). As an example we consider the
abstract equation of the second kind:

Let g € H'/?(T") be given. Find ¢ € H'/2 (T') such that

1 -
=5 @2y + bk (@) = (€ M2y YHEH2IT). (.146)

Here (-, -)12(r) again denotes the continuous extension of the L? (T") inner-product
to the dual pairing (-, -) gr1/2(ryx g—1/2(ry- The equation

vo Do =g (3.147)

in H'/2 (") is equivalent to (3.146), with double layer potential D, where we have
used the relation y, D = —%I + K [see (3.56)]. According to the Riesz repre-
sentation theorem, every functional n € H~!/2

Y € H'/? () such that

(I") has a unique representative

(vom mi2myxa—12@y = 0 ¥) g2 Vve H'/2(T).

With this, (3.146) can be equivalently formulated as follows:
Find ¢ € H'/2 (") such that

(o DO V) oy = (& W maey Yy € HZ (D). (3.148)

The existence and uniqueness of the solution ¢ and the continuous dependency on
the data g is guaranteed by the assumption: y, D : H'Y2(I') - H'Y2(I) is an
isomorphism.

The numerical implementation of the H'/2(I") inner-product is technically
involved. Thus we will discuss in the following under which additional conditions
the H '/ (I") inner-product in (3.148) can be replaced by the L? (T") inner-product
(see, for example, [86, Corollaries A.2 and A.5] and [160]).

Assumption 3.8.10. The operator yy D : H* (I') — H*® (I') is an isomorphism
fors € {0,1/2}.

The following remark shows that Assumption 3.8.10 is satisfied for the Laplace
operator.
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Remark 3.8.11. In the case of the Laplace operator, in [86, Corollaries A.2
and A.5] a Gdrding inequality is shown for the operator yy, D on HY2 (D).
Furthermore, y, D satisfies Assumption 3.8.10.

The properties that have been described in the previous remark could be directly
transferred to the numerical discretization if the operator y; D were seen as an
operator in H'/2 (I"). However, this is usually avoided because of the increase in
complexity for the discretization of the non-local A /2 (I') inner-product. Instead,
Yo D is interpreted as an operator in L2 (I'). Assumption 3.8.10 allows us to for-
mulate the integral equation in L2 (T") as well: Let g € L?(I") be given. Find
@ € L?(T) such that

(Yo DG V) 1ory = (& W2y, V¥ € L2(D). (3.149)

Here (-,-)2(ry denotes the usual inner product in L?(T") (and not the extension
to dual pairings). Assumption 3.8.10 guarantees the existence of a solution in
L2 (I'). Under the additional condition that g € H/2(T), the solution satisfies
¢ € H'Y2(I). Since Yo D : H'Y2(') — H'Y?(T) is, according to the our
assumptions, an isomorphism, it follows that ¢ = ¢.

Remark 3.8.12. (a) Let Assumption 3.8.10 be satisfied and let g € H'/? (T). Then
the solutions from (3.148) and (3.149) coincide.

(b) The statement “yy D : L? (T') — L?(T') is an isomorphism” cannot, in gen-
eral, be transferred to the numerical discretization of (3.149). In general, the
operator yy D does not satisfy any Gdrding inequality in L?(T') and the sta-
bility of the discretization has to be analyzed with special methods for concrete
situations.

3.9 Boundary Integral Equations for the Helmholtz Equation

3.9.1 Helmholtz Equation

Thus far, we have always assumed aminc > ||b||? for the solvability of the bound-
ary integral equations or we have considered the Laplace problem. In this section
we will discuss physical applications from the areas of time-harmonic acoustics
and electromagnetism that are given by the Helmholtz equation with positive wave
number k > 0

Lyu:=—Au—k*u=f. (3.150)

In terms of the spatial dimension we will assume d = 3. As usual, these equa-
tions require suitable boundary conditions. For the exterior problem we impose the
Sommerfeld radiation conditions [see (2.133)]
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-1
lu(®)| < C x|

u for ||x|| — oo. (3.151)

— —iku| < C ||x||”?
or

Here du/dr = (x/ ||x||, Vu) denotes the radial derivative.

As the coefficients of the Helmholtz operator L do not satisfy with the above-
mentioned conditions, special methods have to be developed for the analysis.

The fundamental solution for the operator Ly is given by [see (3.3)]

ciklel

G = .
KO = T

(3.152)

In Exercise 3.1.15 it had to be shown that the single and double layer potentials for
the Helmholtz equation

S0 = [ Gumemds,  (Den = /

S Y€

AR G (x—=y) ¥ (y)dsy

(3.153)
satisfy the Sommerfeld radiation conditions (3.151).
For a given gp € H'Y?(T') the exterior Dirichlet problem (EDP) for the
Helmholtz equation reads [see (2.134)]:

Lyu=0inQ™T, You=gponl, (3.154)

u satisfies the Sommerfeld radiation conditions. '
For given data gy € H™'/2(T") the exterior Neumann problem (ENP) for the
Helmbholtz equation [see (2.135)] is given by

Lyu=0inQT, yfu=gnonT,

.1
u satisfies the Sommerfeld radiation conditions. (3.155)

3.9.2 Integral Equations and Resonances

In this section we will give necessary and sufficient conditions for the existence of a
unique solution of the integral equations for the interior problems of the Helmholtz
equation. For the exterior problem the radiation conditions guarantee that the EDP
and ENP for the Helmholtz equation has a unique solution for every k. Some of
the integral equations that appear during the boundary reduction of the interior and
exterior problems are identical. It follows that, although the boundary value problem
has a unique solution, the integral operators of the exterior problem are not invertible
in the natural Sobolev spaces on I' for every wave number.
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It follows from Theorem 3.1.1, Proposition 3.1.7 and Exercise 3.1.15 that for
¢ € HY2(I) the single layer potential u = Si¢ satisfies the homogeneous dif-
ferential equation L Sy = 0in QT U Q™ as well as the Sommerfeld radiation
condition (3.151). According to Theorem 3.3.1 we have [Si¢] = 0 and the single
layer operator

Vig = vd Skw = yg Skw : HV/2(T) — H'/(I)
is well defined. For the IDP
Lipg=0inQ", yyu=gpeHY*I)
we obtain the integral equation of the first kind: Find ¢ € H~/2(I") such that

Vep. V) 2y = (€. V) 2y V¥ € HV2(D). (3.156)

In the following theorem we will discuss the invertibility of the operator V.

Theorem 3.9.1. The single layer operator Vi for the Helmholtz problem is invert-
ible on H=Y2(T) if and only if k2 is not an eigenvalue of the IDP for the
operator —A:

—Au=kuinQ, yyu=0=u=0inQ".
The null space of Vi is given by
span{yl_v:—Av =k%vin QTAYyv= OonF}.

Proof. Let v be an eigenfunction of the IDP for the Laplace operator with eigen-
value k2, i.e., —Av = k?vin Q7, 7y, v = 0. The single layer potential Sxy, v is
identical to zero on R3. We denote the zero extension of v to all of R® by w. Then
we have [yow] = 0 and [y;w] = —y; v. Therefore the representation formula (3.10)
for the Helmholtz operator is applicable and gives us v = —Sg [y1w] = Sgy;vin
Q7. As v is an eigenfunction of the IDP for the Laplace operator with eigenvalue
k?,wehave Lyv = 0in Q™ and Yo v = 0 and so we have

0=yov="1 (Skyiv) = Vayiv.

Hence y; v is in the zero space of V.

Assume k? is not an eigenvalue of the IDP for the Laplace operator in 2~ and
let w # 0 be in the kernel of V. Then the single layer potential v = S w satisfies
the equation Lxv = 0 in Q™ and from w € Kern (V%) we have y, v = 0. From this
we obtain Ly = —Av—k?v = 0in Q7, y; v = 0. Since k? is not an eigenvalue
of the IDP for the Laplace operator in 27, it follows that v = 0 in Q7 and with
w = —y; v = 0 we arrive at a contradiction.
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Corollary 3.9.2. Although the EDP (3.154) has a unique solution for all k > 0, the
first kind integral equation (3.156) for the EDP that results from the direct method
does not have a solution for all gp € H'?(T) if k? is an eigenvalue of the IDP for
the operator —A.

We have a similar result for equations of the second kind. If we use the single
layer potential ansatz u = Sy for the ENP we obtain the problem: For given data
gy € H™Y2 () find ¢ € H~'/2(I") such that

1
= 5@y + (Kig mram) = (v M2y Y€ HYAD).  (3.157)

Theorem 3.9.3. For every eigenvalue k? of the IDP for the operator —A in Q7
—% I + K is not injective.

Proof. The proof is similar to the proof of Theorem 3.9.1. Let 0 # w € H}(Q7)
be an eigenfunction of the IDP for —A in 2~ and let w* be the zero extension of
this eigenfunction to Q7. Then w* solves the homogeneous equation Liw* = 0 in
QT U Q7 and the radiation condition (3.151) holds. Therefore 0 = Sk (y; w) is in
Q7 [see (3.1.13), (3.19)]. It follows that

(—%1 + K,Q) (y7w) = 0. (3.158)

O

Corollary 3.9.4. The ENP (3.155) cannot be solved for all g5y € H™Y%(T) by the
integral equation (3.157) if k2 is an eigenvalue of the IDP,

We have an analogous result for the integral operators % I + Ky and Wy.

Exercise 3.9.5. Let k? be an eigenvalue of the INP for the Laplace equation and let
0 #w € H'(Q7) be an associated eigenfunction. Then we have

1
(— ST+ Kk)(yl_w) =0, Wilygw) =0, (3.159)

and the integral operators in the boundary integral equations

1
(51+Ke)o =80 Wi =egn. (3.160)

for the EDP and ENP of the Helmholtz equation (both of which have a unique
solution) are not invertible in this case.

Remark 3.9.6. Note that the statements from Theorems 3.9.1 and 3.9.3, Corollar-
ies 3.9.2 and 3.9.4 and of Exercise 3.9.5 remain valid unchanged for the operators
Vi, K_g, K’_k and W_y, as the associated eigenvalue equation —Au = k?u in
Q7 does not depend on the sign of k.



172 3 Elliptic Boundary Integral Equations

These observations raise the following dilemma: The solutions of the exterior
problems (3.154) and (3.155) are uniquely determined for all k; however, the (stan-
dard) boundary integral equations (3.156) and (3.157) cannot be solved for the
resonant frequencies of the interior problems for arbitrary boundary data gp €
H'Y2("), gy € H™Y2(I"). In Sect.3.9.4 we will introduce modified boundary
integral equations which avoid this difficulty.

3.9.3 Existence of Solutions of the Exterior Problem

In this section we will provide a proof of existence for the solutions of the Helmholtz
exterior problem. In the classical point of view the boundary integral operators for
the Helmholtz operator are seen as a compact perturbation of the operators for the
Laplace operator. The disadvantage of this approach is the fact that the boundary
integral equations do not have a solution for certain critical wave numbers, even
though the associated boundary value problem has a unique solution.

One stabilized formulation without critical frequencies is due to Panich and will
be introduced in Sect. 3.9.4.

The easiest situation occurs when the boundary I' is smooth. In this case
Ky : HY2(') — HY2(I') is compact, since the associated kernel function is
then weakly singular, as the following exercise demonstrates.

Exercise 3.9.7. Let I' € C2. Then there exists some C(I") > 0 such that

C (I)
Ix =yl

G (x=Y)| + 115Gk (x—y)| < vx,yel, x#y.  (3.161)

(Hint: Use Lemma 2.2.14.)

If K is compact the integral equation (3.139) becomes a Fredholm equation of
the second kind in H'/2(I"). Furthermore, the injectivity of the integral operator
in (3.139) implies the existence of a unique solution ¢ € H/2(T"), according to
Theorem 2.1.36, provided that k2 does not lie in the spectrum of the INP for the
Laplace equation.

If we decompose Wy into a definite operator and a compact perturbation we may
apply Theorem 2.1.36 to the integral equation of the first kind, Wy = gn, which
arises during the indirect boundary reduction of the ENP. The following lemma
provides the details.

Lemma 3.9.8. Let T’ be a Lipschitz boundary in R3 and let k € R. Then the
following operators are compact:

Vi—Vo:  H Y2T)— HY2()
Koj — Koo : HY2(T) — HY2(T), o€ {+,—}
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. g—1/2 -1/2
Kow— Koo HTV2(I) — HTV2(T), 0 € {+.-}

Wi —Wo: HY2(T)— HV2().

Proof. We consider the Newton potential for the Helmholtz operator (V@) (x) =
Jr3 Gk (x — y) @(y)dsy. Then Ny — Nj is the potential for the kernel function

eikllzl _q

Gi(z) — Go(z) = ATzl and

Ne=No: HE L (R?) — HEFY(R?) Ve eR
is continuous (see Remark 3.1.3). We use the representation Vi — Vp =
Yo(Nk — No)y} [see (3.1.6)]. The continuity of yo : H! (R®) — H'/2(I') implies

the continuity of y : H™ U2y - HcomP(R3) From this we have the compact-

ness of Vi — Vo : HY/2 (') - HY2(T) by considering the composition of the
following mappings
(R%) — HL(R3) — HY(T).

c

loc

H—1/2 r R3 H3
( ) ’ comp( ) —~)/\/0

Here the compactness of the embedding H, C(]1%3) = H,, L (]RB) follows directly

from the compact embedding H3 (Q) — H'(Q) for every compact domain €2
c

(see Theorem 2.6.7). We have Kqx — Koo = v§ (N — No)(yY) foro € {—, +}
(see Definition 3.1.5).

In order to analyze the mapping properties of K — Kg,0, We use the same
approach as in the proof of Theorem 3.1.16. We apply the solution operator T from
Sect. 2.8 for the interior problem (with L < Lj; and A < k?) and define the
functionu € H} (R3) for given boundary datav € H'/2 (T) by

{ Tv inQ7,
u:=

0 inQT.
We define f; € Lcomp (R?) by
fe= (Li)au= —k*Tv  inQ~,
it Y B TR o

Green’s formula (3.10) may be applied thanks to the compact support of u and gives
us the relation

u = N f + Skyyu— Dyv,
U= N()f() + S())/l_u — Dyv.
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We clearly have f, = 0 and by subtracting one equation from the other we obtain
(Dg — Do) v = Ni fic + (Sk — So) y1 Tv. (3.162)

In the following we will use the same notation as in the proof of Theorem 3.1.16.
The mapping properties of Sy — So, N and y; T (see Theorem 2.8.2) imply

(—sz) N
HY2 (M) 2712 (R = H2

comp loc

(]R?,) — Hl})c(RB)9
c
nwr Sk —Si
HY? (1) == H7V2 (D) 75" i (RY) > H (RY).

By combining these results we obtain the compactness of the mapping Dy — Dy :
H'Y2(I') — H (R3). The continuity of the trace operators yi* : H}! (Q%) —
H'2(T') therefore gives us the compactness of the difference mapping
Kox — Koo : HY2 () — HY2 ().

The right-hand side in (3.162) can be decomposed into N fx + Sky; Tv €
Hik (R3\I') and Soy; Tv € Hio (R3\T'). Hence y{ : H} (Q%) — H~Y2(T)
can be applied to every one of these summands, which yields the compactness of
Wi —Wo = —yD: H/2(T) - H~'/2 (). O

We now use Lemma 3.9.8 to show existence for the EDP for the Helmholtz
equation.

Theorem 3.9.9. For every gp € H'Y?(T") the EDP (3.154) has a unique solution.

Proof. We transform the EDP with the representation formula u(x) =
Sruny — Drgp and the direct method to the equivalent boundary integral equation:
Find uy € H~Y2(T') such that

1 _
(Vkun,m 2y = ((——1 + Kk)gD»n) Vne HVA(I). (3.163)
2 L2(F)

According to Lemma 3.9.8 there exists a constant C > 0 with
Ve @) 2(ry = C||</’||§{71/z m— <@, 9) Vo € H-Y2(I)
@

and a compact form ¢(-,-) on H~1/2(I") (given by the sesquilinear form associated
with Vi — V}). The Fredholm alternative is applicable to (3.163) and the injectivity
of Vi implies that (3.163) has a unique solution. According to Theorem 3.9.1, Vi
is injective on H~'/2(I") if and only if k2 is not an eigenvalue of the IDP for the
operator —A. Then (3.163) has a unique solution uy € H~'/2(I") for all gp €
HY2(T'p).

If k2 is an eigenvalue of the IDP for the operator —A then, according to the
Fredholm alternative, the integral equation (3.163) can be solved if and only if the
right-hand side vanishes on the kernel of the adjoint operator of V.
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.. L —ikllx—yl
The adjoint operator of Vj is given by V' (x) = Ir ﬁu (y)dsy. By
virtue of Remark 3.9.6, the kernel of V;* is spanned by y; v with

—Av—k*v=0inQ", Yov=0onT. (3.164)

Let v be a solution of (3.164). Then, with Green’s second formula [see (2.112)], we
have for this v in Q7:

_ 1 _
(71 v, (=51 + Kk)gD) = (y1v. %0 (Dk&D)) 1>y
2 Lz(l")

= (o v 71 (Dkg&D)) 12(ry — (Lkv: Dk&D) 122
+ (v, Lk Drgp) 120 -

All terms on the right-hand side vanish, which is why, according to the Fredholm
alternative, the integral equation (3.163) has a solution. The solutions are unique up
to elements from the kernel of Vg, i.e., up to y; v for eigenfunctions v of the IDP for
the operator —A with eigenvalue k2.

We have shown that the integral equation (3.163) has a solution uy for every k
and every gp € HY2(T). By means of Syuy — Dyxgp we have therefore shown
the existence of a solution of the EDP. O

We can show the existence of solutions for the ENP for all wave numbers with
similar methods.

3.9.4 Modified Integral Equations

Finding a stable numerical solution of the boundary integral equations for the
Helmholtz equation is substantially complicated by the problem of resonant fre-
quencies. Therefore we are interested in modified integral equations that have
unique solutions for all wave numbers.

There are several approaches to transform the exterior problems (3.154) and
(3.155) into modified integral equations that have unique solutions for all wave
numbers. We will present two.

The classical approach is due to Brakhage and Werner [28] and it consists of
using a combined single and double layer ansatz. For globally smooth surfaces it
can be shown that the resulting boundary integral equations have unique solutions
for all wave numbers. We consider the EDP (3.154) and use the indirect method.
Let n € R with

nRek > 0. (3.165)

In Q1 we set
u= Drp—inSge. (3.166)
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This ansatz satisfies Lzu = 01in Q7 as well as the Sommerfeld radiation conditions
(3.151). The jump relations give us the boundary integral equation

1 .
gp =you= (51 + Kk) o —inVxo, (3.167)

an integral equation of the second kind for the unknown ¢. Assuming that I' is
globally smooth it can be shown, as, for example, in [147, Theorems 3.33, 3.34],
that the integral operator %I + Ky — inVy is bijective for all wave numbers k. The
proof is similar to the proof of Theorem 3.9.1, where, instead of the null space of
the IDP, we have the null space of the interior problem

—Au—k*u=0 inQ", yiu+inyou=0,

in which for all  # 0 the term k2 is not an eigenvalue.

The proof of the bijectivity uses the global smoothness of the boundary, which,
according to Exercise 3.9.7, implies the weak singularity of the kernels of K and
K; . Therefore the integral operator in (3.167) is a Fredholm integral operator of the
second kind and is thus boundedly invertible for all wave numbers k.

With the Brakhage-Werner regularization (3.167), the question whether %I +
Ky —in Vg is also bijective for piecewise smooth or general Lipschitz boundaries I',
remains unanswered. In this case the ansatz (3.166) becomes problematic, since the
domains of Dy and Sj do not coincide on non-smooth boundaries.

This problem is solved by an approach due to Panich [179], which guarantees
the existence of a unique solution for all wave numbers for Lipschitz boundaries as
well. We assume that there exists an isomorphism

R:H7Y2*s () > HY/2H((T)  V|s|<1/2 (3.168)
on general Lipschitz boundaries I' that is Hermitian for s = 0.
For the solution of the EDP with Lipschitz boundary we use the ansatz by means
of potentials

u(x) =Dy +in Sk R ' Vo e HY*(I). (3.169)

Then we have Lyu = 0in Q% and (3.151) for all ¢ € H'/2(T"). The unknown data
is the solution of the boundary integral equation

1
gp = y(;"u = Bry := (5 I+ Kk) ¢+inVi R g in Hl/z(l"). (3.170)

Furthermore, we have for the potential # in (3.169)

[youl = ¢ and [yiu] = —inR 'p. (3.171)
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If we eliminate the density ¢ in (3.171) we obtain that « in (3.169) is a solution of
the interior problem

Lreu=0inQ~, inygu+ R(yju) =ingp + Ry, u. (3.172)

Proposition 3.9.10. For n # 0 the integral operator By in (3.170) is injective for
all k.

Proof. Let 0 # ¢ € H'Y2(T) be a solution of Byp = 0. Then u := Dy +
inSk R~ is a solution of the EDP (3.154) in QT with gp = 0. The fact that
the EDP has a unique solution implies that # = 0 in QT. From this we have
that —yy u = [you] = ¢ and —y;u = [y1u] = —in R~ '¢. Green’s formula in
Q7 yields

”V””iZ(Q—) —k? ||u||iZ(Q—) = (y1 u, VO_”)LZ(F) =—( UR_1<P7 §0)L2(F)-

Since R is Hermitian, it follows for 0 # 1 € R that the right-hand side of this
identity is purely imaginary, from which we have (R~1¢, @) L2y = 0. By virtue of
(3.168) we then have ¢ = 0, i.e., we have the injectivity of By. |

The existence of a unique solution of the integral equation (3.170) for all wave
numbers follows from the injectivity and a Garding inequality for By in H'/2(I")
that is uniform in k.

Remark 3.9.11. The choice of R is not unique. In [45], the definition of R is based
on the strongly smoothing integral operator fr e_""_y”(/) (y) dsy. It is also explicitly
analyzed in how far the Galerkin discretization depends on the wave number k.
In [132] the inverse of the Laplace—Beltrami operator for the stabilization of the
integral equation is proposed.

For further readings we refer, e.g., to [55,56,70].

3.10 Bibliographical Remarks on Variational BIEs

In this and the preceding chapter, we presented elements of variational formulations
of boundary integral equations on Lipschitz domains & C R3. We also established
the well-posedness of these variational boundary integral equations by proving coer-
civity of the boundary integral operators in scales of Sobolev spaces on the boundary
I =0Q.

The use of integral equation methods to analyze the existence and unique solv-
ability of elliptic boundary value problems is not recent: it dates back to the
nineteenth century in the work of Fredholm, Radon, Neumann. Ideas from the anal-
ysis of integral equations entered also in an essential fashion into the development
of functional analysis at the beginning of the 20th century. However, in these works
the boundary integral operators were analyzed as mappings between Holder spaces.
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In our presentation, we paid particular attention to the proof of coercivity in suit-
able function spaces of Sobolev type on the surface I'. A key step in the approach
presented here consists in establishing Garding inequalities in function spaces on I"
by “transfer of coercivity” from the elliptic problem in €2 to spaces of traces and nor-
mal derivatives on I'. This avenue to formulating and to studying well-posedness
of BIEs is relatively recent: it originates in work of J.C. Nédélec and Planchard
[171] and, independently, of G.C. Hsiao and W.L. Wendland in [136]. A particularly
lucid exposition of the approach for boundary value problems of linear, scalar, sec-
ond order strongly elliptic differential operators in or exterior to bounded Lipschitz
domains €2 is [72] due to M. Costabel.

The formal approach has, however, a much wider scope than scalar, second order
elliptic problems: it has been extended to quite general classes of boundary value
problems for systems of partial differential equations which are elliptic in the sense
of Agmon, Douglis and Nirenberg in smooth domains as was shown by M. Costabel
and W. Wendland in [74]. This result covers in particular the Lamé—Navier sys-
tem of linearized elasticity in Lipschitz domains 2 where the analogs of the screen
problems of Sect. 3.5.3 are the first kind boundary integral equation reformulations
of elastic fracture mechanics. Their well-posedness was first established by E.P.
Stephan in [219]. These formulations have the appeal that they require only dis-
cretizations of the fracture, and not of the ambient, possibly infinitely large, linearly
elastic medium. We note in passing that the formulation and the analysis of prob-
lems from both elastostatics as well as elastodynamic problems interior or exterior
to bounded domains 2 C R? in function spaces of Holder type is quite mature and
classical by now, see, e.g. [23,150] and the references there. For specific variational
formulations of these boundary value problems for vector-valued functions we refer
to Chap.2 of [137]. Importantly, all concepts presented in Chap. 3 of the present
monograph for scalar, second order elliptic problems carry over to problems of
elastostatics verbatim.

Also due to M. Costabel is the application of the variational formalism to the
derivation of coercive coupled variational boundary integral formulations. There,
a variational formulation of a (possibly nonlinear) elliptic boundary value problem
in a bounded domain is coupled to a linear elliptic exterior problem by means of a
one-sided boundary reduction in the exterior domain. This results, in effect, in varia-
tional formulations of elliptic PDEs with nonlocal and, possibly, nonlinear boundary
integral operators in their variational form. These coupled formulations constitute a
nonlocal exact artificial boundary condition for the artificial reduction of boundary
value problems on unbounded domains to a bounded, truncated domain.

Once again, strong ellipticity of coupled variational formulations on the bound-
ary can be established, as was first explained by M. Costabel in [73]. The variational
approach for deriving well-posed, i.e. strongly elliptic, coupled formulations of
boundary value and transmission problems has subsequently found many applica-
tions, in particular in contact problems in elasticity (see, e.g. [61, 158] for a formu-
lation, and for asymptotic convergence estimates for some Galerkin discretizations
of such coupled formulations).
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In problems of linearized elasticity, this leads once again to boundary integral
variational inequalities on the (a priori unknown) contact surface. Again, the bound-
ary integral operators appearing in these inequalities are shown to be strongly elliptic
by the variational method; also here, the function spaces H*'/2(I'g) enter in an
essential fashion.

A particularly interesting feature of boundary integral reformulations of bound-
ary value problems of homogeneous, isotropic three-dimensional, linearized elas-
ticity is the fact that the fundamental solution and the mapping properties of all
boundary integral operators remain unchanged in the incompressible limit, i.e. in
the passage from the Lamé-Navier equations to the Stokes equations. This is in
stark contrast to the variational formulations of the domain problems, where in the
incompressible limit the function spaces must change, due to the appearance of
the “incompressibility constraint” dive = 0 in €2. This constraint is accounted for
exactly by the fundamental solution (which, in this case, is a matrix-valued inte-
gral operator with kernels derived from the so-called Kelvin fundamental tensor.
As a consequence, variational boundary integral formulations for linearized, three-
dimensional elastostatics do not suffer from the so-called locking effect which is a
well-known problem for domain based Finite Element discretizations of the PDE.

A further important class of elliptic problems for which the use of bound-
ary integral equations is fertile for efficient numerical treatment is computational
electromagnetism. This class of problems has not been discussed in the present
monograph since, unlike the above-mentioned problems, on nonsmooth domains
(such as Lipschitz domains £2), the Maxwell system does not fit straightforwardly
into the variational framework of Chaps.2 and 3. One approach to overcoming this
consists in reformulation of the governing equations in terms of vector potentials;
indeed, in this setting, the governing Maxwell equations can be, at least on smooth
domains €2, recast into elliptic systems which allow for a strongly elliptic bilinear
form (see, e.g. [170] and the references there).

For time-harmonic electromagnetic wave propagation problems, a basic problem
in computational electromagnetism is the numerical solution of the time-harmonic
Maxwell governing equations subject either to “electric” or to “magnetic” bound-
ary conditions (taking formally the place of Dirichlet and Neumann boundary
conditions, but being different from these) in the exterior of a bounded Lipschitz
polyhedron 2 C R3. Degenerate domains like screens, or wires, are again of par-
ticular interest in connection with electromagnetic fields in antenna design. Here,
a direct approach towards variational boundary integral equations on nonsmooth
domains has been developed in recent years. It was initiated by electrical engineers,
starting from the so-called Stratton—Chu representation formula for electromagnetic
fields as potentials of so-called surface currents. The principal issues, definitions and
mathematical results in well-posed variational formulations of BIEs on Lipschitz
polyhedra is recapitulated in the survey [41] and the references there. In particu-
lar, the variational functional framework of the associated BIEs (such as, e.g., the
so-called “Electric Field Integral Equation (EFIE)”), is quite distinct from that pre-
sented in Chaps. 2 and 3 of the present volume. The structure of the trace spaces
on Lipschitz surfaces were only recently characterized in [39]. Likewise, coercive
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variational formulations of the variational BIEs have been obtained by boundary
reduction from corresponding statements of the domain problems in [40]. Many
features of the BIEs of electromagnetics are reminiscent of the (simpler) Helmholtz
equation which was described in Sect. 3.9 of the present volume: in particular the
occurrence of resonance frequencies at which the homogeneous, interior boundary
value problems admit nontrivial solutions causes instabilities of the boundary inte-
gral equations; these can be overcome by the use of the so-called “combined field
integral equation (CFIE)”, see for example [42,43] for details. The numerical anal-
ysis of the BIEs obtained by the direct boundary reduction is complicated in that
the function spaces which are natural for the BIE have an infinite dimensional null
space; accordingly, the standard convergence framework of Galerkin BEM which
we presented in the present chapter does not apply anymore. This problem was
overcome first by S. Christiansen in [64] and later extended to the case of screen
like conductors in [37].

The above references underline the wide applicability of the variational approach
to the systematic derivation of stable boundary integral equation formulations, in
particular on nonsmooth domains 2. Still, the variational approach is historically
rather recent, and relies on transfer of strong ellipticity of a related partial differen-
tial equation together with the existence of a fundamental solution of the differential
operator.

We mention several other approaches for proving stability of boundary integral
operators which do not draw upon the variational approach. Most if not all of these
approaches require, however, surfaces I' which are considerably more regular than
Lipschitz which was sufficient for the variational approach.

One of the earliest approaches is the proof of bounded invertibility of the double
layer potential for the Laplacian by means of showing convergence of the so-called
Neumann series representation of the inverse in classes of Holder continuous func-
tions on I'. We refer to [160] and the references there for more on this topic. In
particular, the bounded invertibility of the boundary integral operators for elasticity
in classes of Holder continuous functions has been investigated in [150].

A second, general approach to the analysis of boundary integral operators is by
interpreting them as particular instances of pseudodifferential operators. In this
way, powerful tools from the theory of these operators can be brought to bear.
This requires, however, boundaries I' which are smooth, closed manifolds in R3.
Still, in this case strong ellipticity in the form of coercivity of the boundary integral
operators can be established directly, i.e. without resorting to ellipticity of a par-
tial differential operator in the domain €2 bounded by I". This is done by proving a
Garding inequality for the principal part of the boundary integral operator A. The
principal part of the operator A at a pointx € I' coincides with the restriction of this
operator on the tangent bundle to I" at x. A key result from the theory of pseudod-
ifferential operators on manifolds states that the Gdrding inequality for A follows
from the positivity of the real part of the principal symbol of the boundary integral
operator A. For many boundary integral operators, the principal symbol is easily
calculated. The verification of its positivity is then elementary. The mathematical
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details of this direct approach to strong ellipticity of boundary integral operators are
nicely laid out in the recent monograph of G.C. Hsiao and W.L. Wendland [137].

So far, all boundary integral equations considered were posed on bounded sur-
faces T' C R3. There are several cases of practical interest where the surfaces I' are
unbounded. We mention only acoustic or electromagnetic scattering on a halfspace
or the integral equations which arise in the modelling of water waves. We refer to the
recent papers [58,59, 186] for more on the formulation and the bounded invertibility
of integral operators on noncompact boundaries I.

Another area of active current research is the wuniformly bounded invertibility
of parametric boundary integral operators. This pertains in particular to acoustic
and electromagnetic scattering problems at high frequencies where the parameter
is the (nondimensional) wave number. In our considerations, the boundary integral
equations for Helmholtz problems were always considered at fixed wave number «;
however, all constants in the stability estimates for the boundary integral operators
which are obtained by the abstract error analysis depend on the wave number « in
an unspecific way. In recent years, considerable progress was made in establish-
ing stability bounds which are explicit in the wave number k for boundary integral
operators for acoustics and electromagnetics (i.e. for the Helmholtz and Maxwell
equations) (see, e.g., [15,45,55,56, 146, 156]).






Chapter 4
Boundary Element Methods

In Chap.3 we transformed strongly elliptic boundary value problems of second
order in domains  C R3 into boundary integral equations. These integral equations
were formulated as variational problems on a Hilbert space H:

Findu € H: b(u,v)y=F (v) Vve H, 4.1)

which, in the simplest cases, was chosen as one of the Sobolev spaces H* (I'), s =
—1/2,0,1/2. The functional F € H' denotes the given right-hand side, which, in
the case of the direct method (see Sect. 3.4.2), may again contain integral operators.
The sesquilinear form b (-, -) has the abstract form

b (u,v) = (Bu,v)r2(r

with the integral operator

(Bu) (x) = A1 (X) u (X) + Az (x) [F k(xyy—x)u(y)dsy xeTlae “4.2)

Convention 4.0.1. The inner product (-, ) 12(ry is again identified with the contin-
uous extension on H=S (I') x H® (T").

The coefficients A1, A, are bounded. For A; = 0, a.e., one speaks of an integral
operator of the first kind, otherwise of the second kind. In some applications the
kernel function is not improperly integrable, and the integral is defined by means of
a suitable regularization (see Theorem 3.3.22).

The sesquilinear form in (4.1) associated with the boundary integral operator in
(4.2) satisfies a Garding inequality: There exist a y > 0 and a compact operator
T : H — H’ such that

Vue H :|b@u)+ (Tu,u)grg| >y llull . 4.3)

S.A. Sauter and C. Schwab, Boundary Element Methods, Springer Series 183
in Computational Mathematics 39, DOI 10.1007/978-3-540-68093-2_4,
© Springer-Verlag Berlin Heidelberg 2011
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The variational formulation (4.1) of the integral equations forms the basis of
the numerical solution thereof, by means of finite element methods on the boundary
I' = 92, the so-called boundary element methods. They are abbreviated by “BEM”.

Note: Readers who are familiar with the concept of finite element methods
will recognize it here. One essential conceptual difference between the BEM and
the finite element method is the fact that, in the BEM, the resulting finite ele-
ment meshes usually consist of curved elements and therefore, in general, no affine
parametrization over a reference element can be found.

Primarily, we consider the Galerkin BEM, which is the most natural method for
the variational formulation (4.1) of the boundary integral equation. In Sect. 4.1 we
will describe the Galerkin BEM for the boundary value problems of the Laplace
equation with Dirichlet, Neumann and mixed boundary conditions, all of which
lead to boundary integral equations of the first kind with positive definite bilinear
forms. We obtain quasi-optimal approximations and prove asymptotic convergence
rates for the Galerkin BEM. In Sect.4.2 we will then study Galerkin methods in
an abstract form for operators that are only positive with a compact perturbation.
We will also present a general framework for the convergence analysis of Galerkin
methods. In Sect.4.3 we will finally prove the approximation properties of the
boundary element spaces.

4.1 Boundary Elements for the Potential Equation in R*

We will first introduce the Galerkin BEM for integral equations of the classi-
cal potential problem in R3 and derive relevant error estimates for the simplest
boundary elements.

4.1.1 Model Problem 1: Dirichlet Problem

Let Q~ C R? be a bounded polyhedral domain, the boundary I' = 9Q~ of which
consists of finitely many, disjoint, plane faces I/, j=1...,J:T= UJJ-:1 /.
In the exterior QT = R3\Q~ we consider the Dirichlet problem

Au=0inQ, (4.4a)
u=gponl, (4.4b)
lux)| = O(|x]| ") for x| > oo. (4.4¢)

In Chap.2 (Theorem 3.5.3) we have shown the unique solvability of Problem
(4.4).
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Proposition 4.1.1. For all gp € H'Y%(T') Problem (4.4) has a unique solution
ue HY(L, Q) with L = —A.

Proof. Theorem 2.10.11 implies the unique solvability of the variational formulation
associated with (4.4) in H' (L, Q") with L = —A. In Sect.2.9.3 we have shown
that the solution also solves (4.4a) and (4.4b) almost everywhere.

Decay Condition: Theorem 3.5.3 provides us with the unique solvability of the
boundary integral equation that results from (4.4) (with the single layer ansatz)
in H~'/2(T"). The associated single layer potential is in H ' (L, Q"’) (see Exer-
cise 3.1.14) and, thus, is the unique solution.

Finally, in (3.22) we have shown that the single layer potential satisfies the decay
condition (4.4c¢). O

We will now reduce (4.4) to a boundary integral equation of the first kind. We
ensure that (4.4a), (4.4c) are satisfied by means of the single layer ansatz (see
Chap. 3)

o(y)

— T dsy, xeQt. 4.5)
drflx—y|

u(®) = (S¢)(x) = [F

The unknown density ¢ from (4.5) is the solution of the boundary integral
equation
Vo = gp onT’ (4.6)

with the single layer operator

@(y)

— s xeTl. 4.7
4 x—yll Y

Vo) (x) = /F

(4.6) defines a boundary integral equation of the first kind. The Galerkin boundary
element method is based on the variational formulation of the integral equation.
Instead of imposing (4.6) for all x € I', we multiply (4.6) by a “test function” and
integrate over I'. This gives us: Find ¢ € H~'/2(I") such that

- _y)
[F(W/’)’I dsx = /1: (/r ypey dsy) n(x)d sy

- [ oM dsy  Yne BT, @48)
T

For the Laplace operator we only consider vector spaces over the field R and not
over C, so that in (4.8) there is no complex conjugation.

The “integrals” in (4.8) should be interpreted as duality pairings in H %(F) X
H™3 (T') in the following way. For ¢ € H~'/2(I") we have Vg € H'/2(I') and, by
Convention 4.0.1, we can write (4.8) as

Findp € HV2(T): (Vo.n) 2@y = (802112 vy e HY2(I). 4.9)
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The left-hand side in (4.9) defines a bilinear form b(-,-) on the Hilbert space
H = H~Y2(T") with
b(p.m) == (Vo.m)r2(r), (4.10)

and the right-hand side defines a linear functional on H~1/2 (") :
F(n) = (gp. 1) r2(r)- (4.11)

Keeping the duality of H~/2(T") and H'/2 (T") in mind, it follows from

| (gD, )2 |
[F(n)] < sup T ||’7||H—1/2(F) = ||gD||H1/2(r)||’7||H—1/2(r)
neH=1/2(D)\{0} ||M||H—1/2(r)

that F is continuous on H /2 (I").
For sufficiently smooth functions ¢, n in (4.10) we have, by virtue of Fubini’s

theorem,
bp. ) = / [ 1) dsyds=b(1.9) 4.12)

4 ||x—

and therefore the form b(-,-) is symmetric. Furthermore, it is also H ~'/2-elliptic
(see Theorem 3.5.3). According to the Lax—Milgram lemma (see Sect. 2.1.6), Prob-
lem (4.9) has a unique solution ¢ € H~Y2(T) for all gp € HY2(I'). In the
representational formula (4.5) this ¢ gives us the unique solution u of the exterior
problem (4.4).

The discretization of the boundary integral equation consists in the approxima-
tion of the unknown density function ¢ in (4.6) by means of a function ¢ which
is defined by finitely many coefficients (ozi)f-vzl in the basis representation. In the
Galerkin boundary element method, this is achieved by restricting ¢, 7 in the vari-
ational form (4.9) to finite-dimensional subspaces, the boundary element spaces,
which we will now construct.

4.1.2 Surface Meshes

Almost all boundary elements are based on a surface mesh G of the boundary T".
A surface mesh is the finite union of curved triangles and quadrilaterals on the
boundary I', which satisfy suitable compatibility conditions. A general element of
G is called a “panel”.

For the definition we introduce the reference elements

Unit triangle: S» = {(51.62) e R?:0< & <& < 1}
(4.13)
Unit square: @2 = (0, 1)°.

Our generic notation for the reference element is 7.
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Definition 4.1.2. A surface mesh G of the boundary I' is a decomposition of T’
into finitely relatively open, disjoint elements v C I that satisfy the following
conditions:

(a) Gisacovering of I':

I' = Ureg T.

(b) Every element t € G is the image of a reference element T under a regular
reference mapping y.. Then y. is called regular if the Jacobian J; = Dy
satisfies the condition

0 < i = nf vai%l (3 (B)v.3: (£) v) = sup |rj€|l£ﬁ (e (£) v- 32 (8) v)

< Amax < 00.

(c) For a plane triangle T € G with straight edges and vertices Py, P; and P, the
regular mapping y is affine:

1e (E) =Po+ & (P —Po) + & (P, — Py). (4.14)

For a plane quadrilateral T € G with straight edges and vertices Py, Py, P, and
P; (the numbering is counterclockwise) the mapping is bilinear:

Xz (é) =P+ §1 (P1 —Po) +§2 (P3 —Po) + §1§2 (P, — P53 +Py—Py).
(4.15)

Figure 4.1 illustrates Definition 4.1.2 for a triangular and a quadrilateral element.

D

—> 5

Fig. 4.1 Schematic illustration of the reference mappings; triangular panel (left), parallelogram
(right)
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Exercise 4.1.3. Show the following:

(a) The affine mapping y in (4.14) is regular if and only if Py, Py, P, are vertices of
a non-degenerate (plane) triangle t, i.e., they are not colinear. Find an estimate
for the constants Amin, Amax from Definition 4.1.2(b) in terms of the interior
angles of 7.

(c) Let Py, Py, Py, P3 be the vertices of a plane quadrilateral T with straight edges.
The mapping y. from (4.15) is regular if all interior angles are smaller than
and larger than 0.

In some cases we will impose a compatibility condition for the intersection of
two panels.

Definition 4.1.4. A surface mesh G of I' is called regular if:

(a) The intersection of two different elements 7, t’ € G is either empty, a common
vertex or a common side.

(b) The parametrizations of the panel edges of neighboring panels coincide: For
every pair of different elements 7, 7" € G with common edge e = T N 7/ we
have

Xtle = Xv © Vr,r/|é’

where é := y.!(e) and y; : T — 7 is a suitable affine bijection.

Remark 4.1.5. Throughout this section we assume that the boundary T is Lipschitz
and admits a regular surface mesh in the sense of Definitions 4.1.2 and 4.1.4. This
is a true restriction since not every Lipschitz surface admits a regular surface mesh.

For later error estimates we will introduce a few geometric parameters, which
represent a measure for the distortion of the panels as well as bounds for their
diameters.

Assumption 4.1.6. There exist open subsets U,V C R3 and a diffeomorphism yr :
U — V with the following properties:

(a) T CU.
(b) For every T € G, there exists a regular reference mapping y. : T — t of the
form )
X = yroyde. ¢ g
where )(f;fﬁ"e : R? — R3 is a regular; affine mapping.
Example 4.1.7.

1. Let T" be a piecewise smooth surface that has a bi-Lipschitz continuous para-
metrization over the polyhedral surface I: AT [ — T. Let GAffine
{rf‘fﬁ“e 1 <i <N } be a regular surface mesh of " with the associated ref-
erence mappings )(iff;‘tﬂ,i it — ¥ Then G = { AT (rafﬁne) : paffine ¢ gafﬁ"e}
defines a regular surface mesh of I' which satisfies Assumption 4.1.6.
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2. For the unit sphere T := {X eR3: x| = 1} one can choose the inscribed dou-
ble pyramid with vertices (£1,0,0)7, (0,%£1,0)T, (0,0, £1)T as a polyhedral
surface T, while AT : [’ — T is defined by xr (X) := x/ ||x||. By means of xr,
regular surface meshes on I' can then be generated through lifting of regular
surface meshes of the polyhedral surface I.

In order to construct a sequence of refined surface meshes for I', in many cases
the procedure is as follows.

Remark 4.1.8. Let ' be the surface of a bounded Lipschitz domain Q C R3. In
the first step we construct a polyhedron r along a bi-Lipschitz continuous map-
ping Xr [ > T (see Example 4.1.7). Let Q‘O‘fﬁ“e be a (very coarse) surface
mesh of [. Then Gy = {‘L’ = xr (tafﬁne) : paffine ¢ ggfﬁ"e} defines a coarse sur-
face mesh of I'. We can obtain a sequence (ngﬁne) ¢ Of finer surface meshes if,
during each refinement, we decompose every panel in ggfﬁ"e into new panels by
means of a fixed refinement method. For triangular elements, for example, we
interconnect the midpoints of the sides and for quadrilateral elements we connect
both pairs of opposite midpoints. This gives us a sequence of surface meshes by
ge = {‘L’ = Jr (.L.afﬁne) - paffine ngﬁne}.

Convention 4.1.9. If  and ™™ appear in the same context the relation between
the two is given by T = xr (rafﬁne).

The following definition is illustrated in Fig. 4.2.

Definition 4.1.10. Let Assumption 4.1.6 be satisfied. The constants c,gipe > 0
(Catfine > 0) are the maximal (minimal) constants in

Catine X = Y1 < 120 (6) = 0 I = Catine [x =¥ Yxy € 797, yreine € goine
and describe the distortion of curved panels T compared to their affine pullbacks
.L.afﬁne.

The diameter of a panel T € G is given by

he := sup [|x —y]

X,yET

and the inner width p, by the incircle diameter of 2",

A :
J Pe

Fig. 4.2 Diameter of a panel and incircle diameter; triangular panel (left), parallelogram (right)
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The mesh width hg of a surface mesh G is given by
hg := max{h; : T € G}. (4.16)
We write / instead of hg if the mesh G is clear from the context.

Remark 4.1.11. For plane panels t, p; is the incircle diameter of t.
The diameters of T and ™" satisfy

-1 _ N -1
Cafﬁnehf = sup ”X - y” = hr*‘”’"e = Cafﬁnehf'
X,ye.rafﬁnc

Definition 4.1.12. The shape-regularity constant k¢ is given by

he
Kg = max —. “4.17)
T€G Pr

For some theorems we will assume, apart from the shape-regularity, that the
diameters of all triangles are of the same order of magnitude.

Definition 4.1.13. The constant gg that describes the quasi-uniformity is given by
qg := hg/min{h; : t € G}.

Remark 4.1.14. In order to study the convergence of boundary element methods,
we will consider sequences (Gg) N of surface meshes whose mesh width hy := hg,
tends to zero. It is essential that the constant for the shape-regularity ky = kg,
remains uniformly bounded above:

sup ky < Kk < 00. (4.18)
LeN
In a similar way the constants of quasi-uniformity q; := qg, have to be bounded
above in some theorems:
supqe < q < o0. (4.19)
{eN

We call a mesh family (Gy)pen With the property (4.18) shape-regular and with the
property (4.19) quasi-uniform.

Exercise 4.1.15. Show the following:

(a) If the surface mesh Gq is regular and if finer surface meshes (Gy), are con-
structed according to the method described in Remark 4.1.8 then all surface
meshes (G¢), are regular.

(b) The constants concerning shape-regularity and quasi-uniformity are, under the
conditions in Part (a), uniformly bounded with respect to {£.
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4.1.3 Discontinuous Boundary Elements

The boundary element method defines an approximation of the unknown density ¢
in the boundary integral equation (4.6) which is described by finitely many parame-
ters. This can, for example, be achieved by (piecewise) polynomials on the elements
T of amesh G.

Example 4.1.16. (Piecewise Constant Boundary Elements)
Let T = 02 be piecewise smooth and let G be a — not necessarily regular —
surface mesh on I'. Then S (g) denotes all piecewise constant functions on the mesh G

Sy :={y € L") |Vt € G: ¥|, is constant} . (4.20)

Since Y € L* (I"), we only need to define \ in the interior of an element, as the
boundary 01, i.e., the set of edges and vertices of the panel, is a set of zero measure.
Every function ¥ € Sg is defined by its values r; on the elements t € G and can

be written in the form
Y(x) =Y Yrbe(x) (4.21)

T€eg

with the characteristic function b, : T' — R of t € G:

1xer,
be(x) 1= (4.22)
0 otherwise.

In particular, Sg is a vector space of dimension N = #{t : © € G} with basis

{he 7€ G

In many cases the piecewise constant approximation of the unknown density
converges too slowly and, instead, one uses polynomials of degree p > 1. In the
same way as in Example 4.1.16 this leads to the boundary element spaces Sé’ . For
their definition we need polynomials of total degree p on the reference element as
well as the convention for multi-indices from (2.67)

]P’pA = span {" : p € N§ A |u| < p}. (4.23)
Forp=1and p =2, ]P’pA contains all polynomials of the form

ago + aoé1 + ané Yag, aio. aor € R for p =1,
2 2 _
ago + a1 + aoikr + axéi + anéié + ané; Yag, a, aor, ax, ain,ap € R for p = 2.

Definition 4.1.17. Let I’ = 92 be piecewise smooth and let G be a surface mesh
of I'. Then, for p € Ny,

S§:={¢:F—>K|vfeg:wox,epﬁ}. (4.24)

We simply write S? or only S if the reference to the surface mesh G is obvious.
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Remark 4.1.18. Note that in (4.24) the functions ¥ € S? do not constitute poly-
nomials on the surface T'. Only once they have been “transported back” to the
reference element T by means of the element mapping x. (see Fig.4.1) is this the
case. The parametrizations . of the elements T € G in Definition 4.1.2 (b,c)
are thus part of the set Sé’ . A change in parametrization y. will lead (with the
same mesh G) to a different Sé’ . Therefore for a mesh G we summarize the element
mappings x. in the mapping vector

X ={x::1€G} (4.25)

and instead of (4.24) we write Sgp’x.

Remark 4.1.19. Note that (4.24) also holds for meshes G with quadrilateral ele-
ments, i.e., with reference element © = (0, 1)2. Since S? does not require continuity
across element boundaries, the space of polynomials Pﬁ in (4.23) can also be
applied to quadrilateral meshes.

For the realization of the boundary element spaces we need a basis for P2, which
we denote by N G, j)(él , SAZ) and which satisfies

Pp=span{Ng: 0<i,j<p i+j<p}. (4.26)
For example, ]’\7(,-,1-) (§1,&) = é’léé, 0 <i+j < pasin (4.23), would be

admissible basis functions.

Remark 4.1.20. (Nesting of Spaces)
We have ]P’pA C ]P’qA forall p < q. Therefore we can always choose a basis in IP’qA

which contains the basis functions from Pﬁ as a subset. The basis functions N G.J)
in (4.23) have this property.

Once we have determined a basis N G, j)(é) on 7, every Y € Sé’ ,, on a panel
T € G can be written as

Yle= > (N(i,j)OXZI)
0<i+j<p

and _
Nijy=Ngpoxs' O0=<i+j<p

spans the restriction {y|, : ¥ € S? (I', G, x)}. In order to give a basis of Sgp’x
suitable indices, we define

tpi={n e NGt |ul < p}.

Thus we have
S, = span {b(u.o(x) : (1. 7) € 1, X G}, 4.27)
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where the global basis functions by (x) with the multi-index / = (u, t) denote the
zero extension of the element function N to I': For

I =Wwt)e,xG=12(G, p) =1 (4.28)
we explicitly have
N'(x),xer,
br(x) := p ) (4.29)
0 otherwise.

Hence, every v can be written as a combination of the basis function by (x):

Yy(x)=Y Yrbi(x). xer, € (4.30)

IeT

Let |G| be the number of elements in the mesh G. The dimension of S, 5, 4 OF the
number of degrees of freedom is then given by

N =G| (p + D(p +2)/2=dim(S§ ). (4.31)

Every functionin yr €S, 5 x is then uniquely characterized by the vector (VD) rez(g.p)
C RV = RZ(9:P) a5 in (4.30).

4.1.4 Galerkin Boundary Element Method

The simplest boundary element method for Problem (4.6) consists in approximating
the unknown density ¢ in (4.9) by a piecewise constant function g5 € S°(T, G).

Convention 4.1.21. The boundary element functions depend on the boundary ele-
ment space SP (I', G, x); in particular, they depend on T, the surface mesh G and
the polynomial degree p. We will, whenever possible, use the abbreviated notation

@s instead of ¢sp -

Inserting (4.30) into (4.6) or into the variational formulation (4.8) leads to a con-
tradiction: since, in general, we have g5 # ¢, (4.6) and (4.8) cannot be satisfied with
¢ = @s, which is why the statements have to be weakened. As g is determined
by N parameters ((pf ) Je7 Lsee (4.29)—(4.31)], we are looking for N conditions to
determine <pIS . In the Galerkin boundary element method we only let the test func-
tion 7 run through a basis of Sé’ in the variational formulation of the boundary
integral equation (4.9). The Galerkin approximation of the integral equation (4.9)
then reads:
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Find ¢s € Sé’, 5 such that

b(ps,ns) = F(ns) Vs € S§ ., (4.32)

with b(-,-) and F(-) from (4.10) and (4.11) respectively.

Remark 4.1.22. (i) The Galerkin discretization (4.32) of (4.8) is achieved by res-
tricting the trial and test functions ¢, 1 to the subspace Sé’,x c H V2T in
the variational formulation (4.8).

(ii) The boundary element solution ¢s in (4.32) is independent of the basis chosen
for the subspace.

The computation of the approximation ¢s requires that we choose a concrete
basis for the subspace. Therefore, [see (4.29)—(4.31)] for a fixed p € Ny, we choose
the basis

(br: 1 €Z(9,p)) (4.33)
for S é’, y- Then (4.32) is equivalent to the linear system of equations:
Find ¢ € R¥ such that
By =F. (4.34)
Here the system matrix B = (B1,J); jer(g, and the right-hand side F =
(F1)jezg.py € RY with I = (i, 7) and J = (v, 1) are given by

BI,‘] = b(b[ bJ) (4.35)
B by (x) by (y) Ny (X) Ni(y)
= [ s s = [ Sty s
Fri= Fbs) = [ eo@bids = [epNimds. @30
T t

Remark 4.1.23. The matrix B in (4.34) is dense because of (4.35), which means
that all entries By j are, in general, not equal to zero. Furthermore, the twofold sur-
face integral in (4.35) can very often not be computed exactly, even for polyhedrons,
and requires numerical integration methods for its approximation. The influence of
this additional approximation will be discussed in Chap. 5. In this chapter we will
always assume that the matrix B can be determined exactly.

Proposition 4.1.24. The system matrix B in (4.34) is symmetric and positive defi-
nite.

Proof. From the symmetry of b(¢, n) = b(n, ¢) we immediately have
Brg =b(b1.by) =b(bs,br) = By,

and subsequently B = BT. Now let ¢ € RY be arbitrary. Then we have
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¢oBo= > @seiBrs =) ¢serb(br.bs)=b (Z erbr. Zwa)
I J

1,J€Z(G,p) 1,J
=b(ps,ps) = y”(/)S”zfl/Z(p) >0
if and only if ¢5 # 0. Since {by : I € I} is a basis of S?, we have ¢s # 0 if and
only if ¢ # 0 € RV . Therefore B is positive definite. O

Thus the discrete problem (4.32) or (4.34) has a unique solution g5 € S, é’ .
The following proposition supplies us with an estimate for the error ¢ — ¢gs.

Proposition 4.1.25. Let ¢ be the exact solution of (4.9). The Galerkin solution ¢s
of (4.32) converges quasi-optimally

1ol .
le —esla—12a) < M, lo —nsllz-1/2ry- (4.37)

The error satisfies the Galerkin orthogonality
b(¢ —¢s.ns) =0  Vns e S?. (4.38)

Proof. We will first prove the statement in (4.38). If we only consider (4.10) for test
functions from S# we can subtract (4.32) and obtain

b(e —¢s.ns) = b(p.ns) —b(ps.ns) = F(ns) — F(ns) =0 Vns € SP.

Next we prove (4.37). For the error es = ¢ — ¢ we have by the ellipticity and
the continuity of the boundary integral operator V' and (4.38)

Ve = @511y < bles.es) = bles, ¢ — ps)
= b(es,p) —b(es,ps) = b(es,p) —b(es,ns) = b(es, ¢ —ns)

< lIblllles | =12yl = nsll =172y

forall ns € S?.
If we cancel ||es || g—1/2(ry and minimize over ns € S? we obtain the assertion
(4.37). O

The inequality in (4.37) shows that the Galerkin error ||¢ — @s|| —1/2(r) coin-
cides with the error of the best approximation of ¢ in S? up to a multiplicative
constant. This is where the term quasi-optimality for the a priori error estimate
(4.37) originates.

Remark 4.1.26 (Collocation). We obtained the Galerkin discretization (4.32) from
(4.8) by restricting the trial and test functions ¢,n to the subspace S? C S.
Alternatively, one can insert s into (4.6) and impose the equation
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Vos)(xs) =gp(xy)  J €Z(G,p) (4.39)

only in N collocation points {xy : J € ZI}. The solvability of (4.39) depends
strongly on the choice of collocation points {xj : J € T}. Equation (4.39) is also
equivalent to a linear system of equations, where the entries of the system matrix

B! are defined by
Bl = / LI (4.40)
B Lam =yl '

Note that B! is again dense, but not symmetric.

The collocation method (4.39) is widespread in the field of engineering, because
the computation of the matrix entries (4.40) only requires the evaluation of one
integral over the surface T, instead of, as with the Galerkin method, a twofold inte-
gration over I'. However, the stability and convergence of collocation methods on
polyhedral surfaces is still an open question, especially with integral equations of
the first kind. For integral operators of zero order or equations of the second kind
we only have stability results in some special cases. For a detailed discussion on
collocation methods we refer to, e.g., [6, 8, 87, 187,207, 215] and the references
contained therein.

‘We now return to the Galerkin method.

Remark 4.1.27 (Stability of the Galerkin Projection). The Galerkin method
(4.32) defines a mapping

ng:H'2T)— S¢ - % = gs.

which is called the Galerkin projection. Clearly, H§ is linear and because of the
ellipticity of the boundary integral operator V- we have

V”H§‘P”%{—1/2(F) = V||§0S||§{—1/2(I~) < b(gs,ps) = b(g, s)

IA

1Bl z-1720) TS @1l =172y

from which we have, after canceling, the boundedness of the Galerkin projection
Hg W ) — H™3 (I") independent of the mesh G:

Il
TSl r-1/2(r) < THQDHH*I/Z(F)- (4.41)

The quasi-optimality (4.37) and the boundedness of the Galerkin projection
combined with the following corollary give us the convergence of the Galerkin
BEM.

Corollary 4.1.28. Let (Gy)yen be a sequence of meshes on I with a mesh width
he = hg, and let hy — 0 for £ — oo. Then the sequence (pg)gen 0f boundary
element solutions (4.32) in Sy = ng converges to ¢ for every fixed p € Ny.
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Proof. Since S ? cS f for all p € Ny, we will only consider the case p = 0. S ? are
step functions on meshes whose mesh width converges to zero. The density follows
from the construction of the Lebesgue spaces

—”’"LZ(F)
0 _ 72
U, en 56 = L*(I)

and from Proposition 2.5.2 we have the dense embedding L? (') ¢ H~/2(T").
Forp € H -1/2 (I') and an arbitrary ¢ > 0 we can therefore choose a ¢ from
L? (") and an £ € N, combined so that @y € SO such that

lo = @lla-120y <€/2 and 6 = Gell L2y < /2.

From this we have

l = @ell 172y < Il = Glla-12y + 16 = @ellg-120y < 5 +5 <.
The quasi-optimality of the Galerkin method gives us
o= el < DL lo = Gl < o),
As ¢ > 0 is arbitrary, we have the assertion for { — oo. O

4.1.5 Convergence Rate of Discontinuous Boundary Elements

We have seen in Proposition 4.1.25 that the approximations ¢s € S from the
Galerkin boundary element method approximate the exact solution ¢ of the equa-
tion of the first kind (4.9) quasi-optimally: the error ¢ — @s, which is measured in
the “natural” H~'/2(I")-norm, is — up to a multiplicative constant — just as large as

min {|lg — sl g-1/2r) : ¥s € S} (4.42)

which is the error of the best approximation in the space S. The convergence rate of
the BEM indicates how fast the error converges to zero in relation to an increase in
the degrees of freedom N . Here we will only prove the convergence rate for p = 0,
while the general case will be treated in Sect. 4.3. We begin with the second Poincaré
inequality on the reference element 7.

Convention 4.1.29. Variables on the reference element are always marked by a
“*”_If the variables X € T and X € T appear in the same context this should
always be understood in terms of the relation x = y (X). Derivatives with respect
to variables in the reference element are also marked by a “"”. We will write, for
example, V as an abbreviation for Vi . Should the functionsu : t — Kandu : T —
K appear in the same context, they are connected by the relation u o y; = ii.
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Proposition 4.1.30. Let ¢ C R? be the reference element, § € H' (%) and §¢ :=
I%I [; ¢ dX. Then there exists some ¢ > 0 such that

¢ —oll2z) < CIVElL2z), (4.43)
where ¢ depends only on 7.

Proof. The assertion follows directly from the proof of Corollary 2.5.10. O

In the following we will derive error estimates for a simplified situation. We will
discuss the general case in Sect.4.3. Here we let I" be a plane manifold in R3 with
a polygonal boundary. As integrals are invariant under rotation and translation, we
assume without loss of generality that

I' is a two-dimensional polygonal domain, (4.44)

i.e., we restrict ourselves to the two-dimensional approximation problem in the
plane.

Furthermore, let G = {7; : 1 <i < N} be a surface mesh on I" of shape-regular
triangles with straight edges and with mesh width 4 > 0. Then the triangles 7 € G
are affinely equivalent to the reference element 7 via the transformation (4.14):

T3x = y:(X) =Py + JX, X €T, (4.45)

where J is the matrix with the columns P; — Py and P, — Py (see Fig.4.1). With
(4.45) and the chain rule

I A N R
0xg Bxl Bxa 00X 0xqy

the relation

V=0TV, dx=(det])dx =2|t|dx (4.46)
follows. This leads to the transformation formula for Sobolev norms
SR SA2 e IfI
V152, = [ 1VoPdt = 73 | (Vo) T (Veyax
T
i,x / IVol|? dx, (4.47)

where A, denotes the largest eigenvalue of JJT € R2*2. Furthermore, we have for
the left-hand side of (4.43)

I Izl
”(P - ¢0||L2(r) | | ”(P ¢0||L2(r) (4.48)
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with @ : = rl f @dx. If we combine (4.48) with (4.43) and (4.47) we obtain

Tl ~ . I | .
”(P _‘Po”iz(r) = m”‘p - ‘Po“iz(;) = | |||V§0||L2(r) = ZA ”V(p”LZ(f) vVt e g
(4.49)
Exercise 4.1.32 shows that
Ae < Py —Po|® + [Py — Py ||* < 272, (4.50)
From this we have
le = goll L2ey < V28he |9 p1(r).- (4.51)

Squaring and then summing over all T € G leads to the following error estimate.

Proposition 4.1.31. Let (4.44) hold. Let G be a surface mesh of T'. Let ¢ € L*(I)
with ¢|, € H'(t) for all T € G. Then we have the error estimate

1/2
mln ”@ WHLz(F) = «/—C (Zh |¢|H1(r)> . (4.52)

T€eg

For ¢ € HY(T) the error estimate can be simplified to

min [l¢ — ¥l 2y < V2¢hg |0l g1y (4.53)
weSS

Exercise 4.1.32. Let © be a plane triangle with straight edges in R? with vertices
Py, Py, Ps. Let the matrix J and the eigenvalue A, be defined as in (4.45) and (4.47)
respectively. Show that

Ae <Py =Po|® + [P — P>,

From the approximation property we will now derive an error estimate for the
Galerkin solution.

Theorem 4.1.33. Let ' be the surface of a polyhedron. Let the surface mesh G
consist of triangles with straight edges.
For the solution ¢ of the integral equation of the first kind (4.6) we assume that
foran 0 <s <1 we have
¢ € H*(T). (4.54)

Then the Galerkin approximation ¢s € S g satisfies the error estimate
le = esll g2y = C B2 lgllas oy (4.55)

Proof. The conditions of the theorem allow us to apply Proposition 4.1.31. With
(4.37) we obtain for the Galerkin solution ¢g the error estimate
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bl .
lo —esllg-120m) =l — ng ellg-12ry < — min _|lo — Vsl g-1/2(r)-
Y yses

The definition of the H /2 (I')-norm gives us

(e —v¥s.Mr2r
le —slg-120y = sup @ (4.56)
etz angey  IMla2@

We will first consider the case ¢ € H!(I") and choose s elementwise as the mean
value of ¢

. 1
Py :=1vys with yg| = m/(pdx, T €Q,
T

i.e., P is the L2-orthogonal projection onto S(g). Hence it follows from Proposi-
tion 4.1.31 that

I¥slle2ay < lellizay, e = ¥slleaay < 20ell2mys 1o = ¥sllea < chllella -
“4.57)

If in Proposition 2.1.62 we choose T = I — P we have T : L2 (I') — L2 (T")
and T : H! (T') — L? (T'). For the norms we have, by (4.57), the estimates

ITL2ryer2ry =2 and  ||T||L2ryem1 @) < ch.

Proposition 2.1.62 implies that T : H* (') — L2 (I") forall 0 < s < 1 and that
1T 220y mrs(ry < ch’.
This is equivalent to the error estimate

le = ¥sli2a@y < chllellasa)- (4.58)

In order to derive an error estimate for the H~1/2

that the equality

(I')-norm, we use (4.56) and note

(@ —¥s. M2yl = [ (@ —V¥s.n—ns) 2y |

holds for an arbitrary ng € S(g). By using ¢ € H*(T'), n € H'/2(I") and (4.58) and
by choosing ns elementwise as the integral mean value of 7, we obtain the estimate

(o —=¥s.mr2my| = (@ —¥s.n=ns) 2| < le = V¥sliz@y In=nsllLzm

< ch* ol as a1l g2 ).
O
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The error estimate (4.55) shows that the convergence rate h° +1/2 4f the BEM
depends on the regularity of the solution ¢. In Sect. 3.2 we stated the regularity —
the maximal s > 0 such that ¢ € H~'/2%5 (T") — without knowing the exact solu-
tion ¢ explicitly. Ideally, ¢ is smooth on the entire surface (s = oo) or at least
on every panel. The convergence rate would then be bounded by the polynomial
order p of the boundary elements, due to the fact that the following generalization
of Theorem 4.1.33 holds.

Corollary 4.1.34. Let the exact solution of (4.9) satisfy ¢ € H5(I') forans > 0.

Then the boundary element solution g € Sé’ satisfies the error estimate

lg — sl 12y < chy > SP o) s ), (4.59)

for a surface mesh G of the boundary T, which consists of triangles with straight
edges. Here the constant ¢ depends on p and the shape-regularity of the surface
mesh.

The proof of Corollary 4.1.34 will be completed in Sect.4.3.4 (see Remark
4.3.21).

4.1.6 Model Problem 2: Neumann Problem

Let Q= C R3 be a bounded interior domain with boundary I' and Q7+ := R3\Q~.
For gy € H~'/2(T") we consider the Neumann problem

Au=0 inQv, (4.60)
yiu = gn onT, 4.61)
lux)| < C x| for ||x|| = oo. (4.62)

The exterior problem (4.60)—(4.62) has a unique solution u, which can be
represented as a double layer potential

1 0 1
u(X)=—[ (y)— ——dsy, xeQt. (4.63)
ar Jo O omy =y

Thanks to the jump relations (see Corollary 3.3.12)
—-1xeQ,
1 0 1 1 . .
— | ————dsy = —3 X € I'and T is smooth in x
4m Jr ooy x—y]

0 xeQ*t
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u(x) in (4.63) does not change if a constant is added to ¢. If we put (4.63) into the
boundary condition (4.61) we obtain the equation

d 1 0 1
= G ony dsy | = I. (464
v ony (471 [p(p(y) any [x —y|| SY) gN (x), X € (4.64)

The following remark shows that the derivative d/dny and the integral do not
commute.

Remark 4.1.35. The normal derivative 3/ dng, applied to the kernel in (4.64), yields

onony [Ix—yll ~ [x—y|? Ix—yl°

2 (neny) (e x—y)(ny.x—y)

Therefore the kernel of the associated hypersingular integral operator is not inte-
grable.

There are three possibilities of representing the integral operator W¢ on the
surface: (a) by extending the definition of an integral to strongly singular kernel
functions (see [201, 211]), (b) by integration by parts (see Sect.3.3.4) and (c) by
introducing suitable differences of test and trial functions (see [117, Sect. 8.3]). In
this section we will consider option (b). The notation and theorems from Sect. 3.3.4
can be simplified for the Laplace problem, so that they read

curlr ¢ 1= yo (grad Z_¢) x n,

1 1
b(w,n)=// tourlr ¢ @) eurlr 5 69 g,
rJr 4 Ix =yl

where Z_ : HY2(I') — H'(Q7) is an arbitrary extension operator (see Theo-
rem 2.6.11 and Exercise 3.3.25).

The variational formulation of the boundary integral equation is given by (see
Theorem 3.3.22): Find ¢ € H'/2(T") /K such that

blp.n) =—(gn.Mr2qy  Yne HY2(D)/K. (4.65)

In Theorem 3.5.3 we have already shown that the density ¢ in (4.63) is the unique
solution of the boundary integral equation (4.65). The proof was based on the fact
that the bilinear form b (-, -) is symmetric, continuous and H /2 (T") /K-elliptic.

4.1.7 Continuous Boundary Elements

The Galerkin method is based on the concept of replacing the infinite-dimensional
Hilbert space by a finite-dimensional subspace. The bilinear form that is asso-
ciated with the hypersingular integral operator is defined on the Sobolev space
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H'2(I") /K. As the discontinuous boundary element functions from Example
4.1.16 and Definition 4.1.17 are not contained in H'/2 (I") /K (see Exercise 2.4.4),
we will introduce continuous boundary element spaces for the Neumann problem.

We again start with a mesh G on the boundary I'. In order to define continuous
boundary elements, we assume (see Definition 4.1.4):

The surface mesh G is regular. (4.66)

This means that the intersection T N T’ of two different panels is either empty, a
vertex or an entire edge. Furthermore, the boundary elements are either triangles
or quadrilaterals and are images of the reference triangle or quadrilateral T respec-
tively (see Fig.4.1). Note that the boundary edges of the panels “have the same
parametrization on both sides” in the case of continuous boundary elements (see
Definition 4.1.4).

We assume that the boundary I' is piecewise smooth (see Definition 2.2.10 and
Fig.4.1) so that the reference mappings y; : T — 7 can be chosen as smooth dif-
feomorphisms. As in the case for discontinuous boundary elements, the continuous
boundary elements are also piecewise polynomials on the surface I'. When using
discontinuous elements, a boundary element function @y is locally a polynomial of
degree p in each element T € G:

YVt eg: ¥s © Xt E]P’pA(%).
With continuous elements we have for t € G:
P ﬁ if 7 is a triangular element,

¥s 0 Xt € ]P’Ir7 = (4.67)
PS5 if 7 is a quadrilateral element,

where for p > 1 the polynomial space IP’I,A is defined as in (4.23) and

IP’E = span{é{é{ :0<i,j<p}

Now we come to the definition of continuous boundary element functions of
degree p > 1.

Definition 4.1.36. Let I" be a piecewise smooth surface, G a regular surface mesh
of 'and y = {y: : v € G} the mapping vector. Then the space of continuous
boundary elements of degree p > 1 is given by

SE =1{p e C'() VT €G: ¢l 0 € P}

In order to make the distinction between continuous and discontinuous boundary
elements of degree p we will from now on denote discontinuous elements by .S 5; "
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Just like the space S?>~! of discontinuous boundary elements, the space S 70 is
also finite-dimensional. In the following we will introduce a basis {¢; : I € I} of
S7:0 In contrast to S?>~!, the support of the basis functions in general consists of
more than one panel and the basis functions are defined piecewise on those panels.
We begin with the simplest case, p = 1.

Example 4.1.37. (Linear and Bilinear, Continuous Boundary Elements)
The shape functions N (X), X = (X1, X») on the reference element T are:

e In the case of the unit triangle with vertices Py = (0,0)T, Py = (1,0)T, P, =
(1, DT [see (4.13)], given by

No@®) =1— %1, (4.68)
Ni&) = &1 — %2,
No®) = %>

and

e In the case of the unit square with vertices Py = (0,0)T, Py = (1,0)T, P, =
(1, DT, Py = (0,1)7, given by

No®) = (1 —&1)(1 - %2), (4.69)
Ni(R) = %1(1 — %),
No®) = (1 — %) %,

N3®&) = &1

We notice that the shape function N i is equal to 1 at the vertex P; of the reference
element 1 and vanishes at aﬂ other vertices (see Fig. 4.3). R
It holds P2 (%) = span{N; : i =0, 1,2} and P2 (7) = span{N; : i =0,...3}.

For the definition of the boundary element spaces of polynomial degree p we
have to distinguish between quadrilateral elements and triangular elements. For the
reference element 7 € G and p € Ny we define the index set

9,

Fig. 4.3 Reference elements S,
% = Sz (left) and % = Qz

(right) and nodal points for
]Pal? 0 1 0 1
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Fig. 4.4 Nodal points P( ) 22 0.2 1,2 22
for the reference triangle (left) ’
and for the unit square (right)
1,1
1,1 21 0,1 : 2,1
S, 0,
0,0 1,0 2,0 0,0 1,0 2,0
B {(i,j) € NOZ 0<j<i< p} in the case of the unit triangle, 4.70)
P {G.j)eNg:0<i,j<p} inthecaseof the unit square. ’

We will omit the index T in L if the reference element is clear from the context.

Example 4.1.38 (Boundary elements of degree p > 1). The trial spaces P}, PJ

in (4.67) are spanned by the functions N Ep z) € IP’Z which will be defined next. The

nodal points for the reference element T are given by
P (i j)T Vi j) e @71
(G pp) ’ p :

(see Fig.4.4).
For(i,j) € t; the shape function N Elp i.) is characterized by

S50 i S 5@ { Lk, O) =G.Jj),
N eP, and N P = : ..
.9 P E0) =00 (k.0 € E\ 16 )3
(see Theorem 4.1.39).
Theorem 4.1.39. Let k € N. Then every q € IP’,? is uniquely determined by its

values in Ty 1= {(i/k,j/k) (i, j) e L,i}.

The set Xy is called unisolvent for the polynomial space IP’kf because of this
property.

Proof. A simple calculation shows that
dimP{ = 3.
Therefore it suffices to prove either one of the following statements (a) or (b):

(a) For every vector (b,),cx, there exists a g € ]P’kf such that ¢ (z) = b, for all
VA R
(b) If g € P{ and g (z) = O forall z € Xy then g = 0.
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Case 1: T = (0,1)*: For pu € Lk we define the functlon NM by
s
NM(X) —H]—1Hz,_0 -

l/#ﬂ/ MJ _IJ

Then N, € PZ with N, (u/k)y=1and N, (” ’—2) = 0forall (i1,i2) € (f\ {1}.
Now let (b“)u <. be arbitrary. Then the polynomial g € Pf

g = buNu(x)
ped,

satisfies property (a).
Case 2: 7 is the reference triangle. As in Example 4.1.37 we set

/All (X) = 1—)%1, /A\z (X) = )%1 —)%2, A3 (X) = )’52.
Clearly, these functions are in Plf and have the Lagrange property
VI<i,j<3:%(A;) =6, with Aj =(0,0)T,A; =(1,0)T,A; = (1,1)T.

1. k = 1: For a given (b;)?_, € R?, g € Py:

3
q(x) =) biki ()
i=1
clearly has the property (a).
2. k=2Forl <i<j<3A;):= (Ai + Aj) /2 denote the midpoints of the

edges of 7. We define
Ni=Ah(hi-1)1=i=3
Ngjy=4AA;, 1<i<j<3.

Then we clearly have Nk, N(i,j) € sz and

]:\:,i( )—811 v (A(H))_O Vi,k,@,
N, j (Ar) =0 N, p (A(k’()) = (Si,kgj,e Vi, j,k, L.

For a given {b, : z € X5} = {b;, bk}, the polynomial ¢ € Pf defined by

3
g =Y BN+ D broNwe X

i=1 1<k<€<3

has the property (a).
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3. k = 3: This case will be treated in Exercise 4.1.40.
4. k> 4:Letq € IP’kA with g (z) = 0 for all z € X. Then g vanishes on all edges
of 7. Therefore there exists a ¢ € IP’kA_3 such that

g =Mrds¥ and YzeXpNz:y(z)=0.

(Note that T is open.) The problem can thus be reduced to
(1//eIP’kA_3)/\(VZ€Zkﬂ7?:1/I(Z)=0):>1/IEO. 4.72)

Property (b) follows by induction over k as follows.

~r . . . _ 2 1 \T _ k 1 \T _
Let 7’ be the triangle with vertices A = (g57. 757) - B = (m, m) ,C=

k_ k=1)T Then we have S, N % =: 5/ C 7. Th formai
m, m . €n we have k T =. k cT. e transtormation

T:%—>%’:T§=A+(1—k3j)é

is affine and therefore 1/} =YoT € IP’kA_3. Furthermore, we have T_IE;( =
Yx—3. Hence (4.72) is equivalent to

(&ePkA_3>/\(VzeEk_3:&(z):O)zMﬁEO.

This, however, is statement (b) for k <— k — 3. Since the induction hypothesis
for k = 1,2, 3 is given by steps 1-3 in the proof, the assertion follows by virtue
of the equivalence of the two statements (a) and (b). O

Exercise 4.1.40. Let T be the unit triangle. For ]P’3% construct a Lagrange basis for
the set of mesh points X3 (see Theorem 4.1.39).

In combination with the polynomial space IP’; on 7 we define an interpolation

operator 17 for the set of nodal points p = (ﬁ 8)}))( ) for continuous
)G )e
functions ¢ € C° (?) by
TPy — PP\ y@
7p:= Y ¢ (P(,.,j)) N (4.73)

@i,))ety,

The Sobolev embedding theorem (Theorem 2.5.4) proves the continuity of the
embedding H' (2) < C° (?) thanks to 7 C R2 for 7 > 1 and therefore 17 is
defined on H? (%), thus
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\_/XT\\ 0,

Fig. 4.5 Quadratic triangular and quadrilateral elements which share a common edge. The com-
patibility of the parametrizations ensures that the midpoints (cross marks) of the pullbacks of the
common edge in the reference elements are mapped to the same surface points

17 : H'(?) — P!  and continuous: HT" H < 00
© r CO(?)<H!(?)

One obtains the set of nodal points on the surface by lifting the set of nodes on
the reference element by means of the element parametrization

7= {X, (Pep):vred, Vi j)e L;}. (4.74)

Clearly, in a mesh G on I' there will be nodal points that lie in more than one
element, more precisely, that lie in their closures. As an example, consider Fig. 4.5
with two panels that have a common edge.

If the parameter representation y, y./ of the panels t, 7’ € G is not compatible,
the edge midpoint “x” on the common edge will be mapped to different points

in 7, 7/, depending on whether it is associated with t or t’. Thus, regular element
mappings (see Definition 4.1.4) must parametrize edges e = TN7' “identically from
both sides”. In the following we will always assume in the definition of continuous

boundary elements Sé’,’; that G and y are regular.

Example 4.1.41 (p-Parametric Boundary Elements). Let G be a regular mesh on
I" and let ¢ > 1 be given and fixed. Then we can approximate a regular, generally
non-linear, parametrization Y. : T —> t© € G by means of a p-parametric element

mapping

@ = Y PP ON? ®. ket (4.75)
(.j)ed
where PE?)J-)(‘E) = Xz (ﬁg%) denotes the lifted nodes of the reference element.
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Remark 4.1.42. In practical applications the construction (4.75) is used for p = 1

and p = 2 with the shape functions Z/\\’Elpi) for the set of points /ng’i) in (4.71). In

every case the approximation panel T := ) (7) interpolates the exact panel T at the
points Pg}). It is known from interpolation theory (see Sect.7.1.3.1) that, for the
quality of the approximation, the choice of interpolation points becomes essential
for high orders of approximation such as p > 3. For p > 3 the images of the
Gauss—Lobatto points for the unit square represent a better choice for the set of

nodes Pg’i.). Similar sets of points are known for the unit triangle (see [16, 130]).

In the following we will always assume that the y describe the surface I' exactly.
The influence of the approximation of the domain on the accuracy of the boundary
element solution is discussed in Chap. 8.

We define the space of the continuous, piecewise polynomial boundary elements
of degree p > 1 by a basis by. For this, let Z be, as in (4.74), the set of all nodal
points in the mesh G. The basis function bp for the nodal point P € 7 is characterized
by the conditions

0 : 1 forP =P,
bpe SZ° and bp(P) = (4.76)
0 forP #P, P el

For a nodal point P € 7 we define a local neighborhood of triangles by I'p :=
\{T : t € G, P € T}. Then we have

supp(bp) = T'p. 4.77)
In order to derive a local representation of the basis functions by element shape

functions, we need a relation between global indices P € 7 and local indices (i, j) €
tp-Fort € Gand I = (i, j) € ¢}, we define a mapping ind : G x ¢}, — 7 by

ind(z. 1) := 1 (Pp) € T. (4.78)

With this we have, fort € G, I = (i, ) € L; and P = ind (7, ) € Z, the relation
bple = N{ ) = Njoy7l (4.79)
In the following we will show that the functions in Sé’,’g are Lipschitz continuous

and are thus contained in H! (T"). In order to compare the Euclidian distance with
the surface distance, we introduce the geodesic distance

distp (x,y) := inf {length (yx,y) : ¥xy is a path in T" that connects x and y}

and the constant gr
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distr (x,y) }

sup { (4.80)
x,yeI' ”X - y”

8r =
Remark 4.1.43. The functions ¢s € Sé;g are Lipschitz continuous

lps(x) —os(Y)| < C Ix -yl vx,y €T,

where C dependson T, G, y and gr.

Proof. The continuity of g € S 5”2 follows directly from the definition so that we
only need to prove the Lipschitz continuity. Letx, y € I" and let yx y be a connecting
path with minimal length on I'. Let (r J')[/I'=o C G be a minimal subset of G with the
property:

q
X€T, YT, nyCJT
j=1

V1<j<g:7,1N7T,isacommonedgee; ande; N yyy # 9.

We fix the points Mj one; Nyxy, 1 < j < g andset Mg = xand My =y.

. . 1 L .
Without loss of generality we assume that all (M j)(j.:o are distinct; otherwise we

simply eliminate points that appear in the sequence more than once. Then, by the
continuity of g5, we have

q
s (¥) — ¢s (X) = g5 (Mg41) — s Mo) = Y _ (s (M;11) — g5 (M;)).

Jj=0

The points M1, M; are in the panel t;. Since ¢g|, is the composition of a
polynomial with a diffeomorphism, these restrictions are Lipschitz continuous. With

- lps (x) — ¢s ()]
Cy = sup ———

xyer  [[x=yl

we have
o5 (M 11) — s (M;)] < cc [Mj1 =M || < oL (ym;m,44) -

where L (yMj M, +1) denotes the length of the shortest connecting path in I" that
connects M; with M; . Finally, with (4.80) we have

05 )= o5 001 = (max e, ) L 0n) = e (max cs, ) Il

which is the Lipschitz continuity of ¢g. O
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4.1.8 Galerkin BEM with Continuous Boundary Elements

The inclusion S2’ 2 C H'Y2(T) of the continuous boundary elements permits the
Galerkin dlscretlzatlon of the hypersingular boundary integral equation:
Find g5 € SZ’ % /K such that

b(gs.ns) = (gn. 1) 12 Vs € S20/K. 4.81)

The ellipticity (Theorem 3.5.3) implies the existence of a unique solution of Prob-
lem (4.81). The system matrix of the hypersingular integral equation has similar
properties to the matrix of the single layer potential (see Proposition 4.1.24).

Proposition 4.1.44. The system matrix W of the bilinear form b : Sé”O/R X

Sé”O/R — R in (4.65) is symmetric and positive definite. The entries Wy j, I,J €
T have the explicit form

Ir by (x), curlp b
Wiy = / / {eurlr b1 (). curle b7 9) 4 75 = wy . (4.82)
rJr 4 x =y

The integrals in (4.82) are, according to Remark 4.1.43, weakly singular and
therefore the matrix entries are well defined. We can write the actual generation
of the matrix by means of integrals over single panels, with the help of the index
allocation (4.78). In the following we will give an algorithmic description in the
form of a pseudo programming language.

procedure generate system_matrix;
for all 7,7 € G do begin )
forall I = (i,i") €5, J =(j.j) € Lfdo begin

W,Itl : //G (x—y) <curlp (N(, inoxXT (x)) curlp (N(J inexr (y)))dsydsx,

=ind(¢,1); L:=ind(t,J); Wi =Wk + W5’
(4.83)
end;end;

Exercise 4.1.45. Let t,t € G be panels with reference elements %, t and refer-
ence mappings X, X:. The Jacobian of the transformation is denoted by J; :=

51)(,,92)(,] and we set VL = (32,—91). For sufficiently smooth functions
u : T — R prove the relation

geeurlpuo yp = J. Vi,

where g, 1= /det (JIJ,) and i == uo y.
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For the local system matrix Wr{;J in (4.83) we have the representation

/ [ <<J1/V\J']/\7(i,i’)> ), (Jt/V\LN(j,J")) (y)>d§7d§(
T Jt

A [ %) — x: D

(Hint: Use Exercise 3.3.25.)

In the same way as in Proposition 4.1.25 we obtain a quasi-optimal estimate for
the Galerkin error for continuous boundary elements on a regular mesh G.

Proposition 4.1.46. The Galerkin approximation ¢s € Sg 0 of the solution ¢ of
the hypersingular boundary integral equation converges quasi-optimally:

ol .
lg = esllmz2eymx = —= min ¢ =vslgi2mx- (4.84)
14 wSeSé"

The Galerkin projection H(gp) c H'2(I')/K — Sé”O/K, given by H(gp)go = ¢s, Is
stable: »
IS | 2oy k- m1/2ayx < D11/ v, (4.85)

where the norm of the bilinear form b(-,-) is given by

bl = bp.n)
1ol = sup sup
weH1/2(T)\{0} ne H 1/2()\{0} ||‘/’||H1/2(F)/K||77||H1/2(F)/K

[see (2.29)].

Thanks to the stability result (4.85), the search for convergence rates of the
Galerkin BEM is again reduced to the study of the approximation properties of
the spaces S2°°.

4.1.9 Convergence Rates with Continuous Boundary Elements

In order to find convergence rates for the boundary element approximation ¢g in
(4.81) of the hypersingular equation (4.65), we need approximation properties of
the continuous boundary element spaces, which we will now specify. For this, let
the boundary I be bounded and piecewise smooth in the sense of Definition 2.2.10.

Remark 4.1.47. The partitioning of I which is employed in Definition 2.2.10 of
piecewise smoothness is denoted here by C = {I'; : 1 <i <gq} instead of G in
order to distinguish the notation from the boundary element mesh G and its panels
T € G (cf. Definition 4.1.2). In this light, the cardinality q of C depends only on
I" and is, in particular, independent of the discretization parameters. However, we
always assume that the boundary element mesh is compatible with C in the sense
that, for any v € G, there exists a I'; € C with T C T7.
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We will prove the approximation property and the convergence rates for the
Galerkin solution under the assumption that the exact solution belongs to the space
Hy,, (T') which we will define next.

Definition 4.1.48. Let I" be piecewise smooth with partitioning C:= {I';:1 <i <g}:

(a) Fort > 1, the space H}fw (T") contains all functions ¥ € H! (I") which satisfy
VI eC: W|1—~[_€HZ(F,')

and is furnished with the graph norm

1/2

W lag,a = D Wk, | - (4.86)

T;ecC
(b) For0 < < 1, the space H}, (T') equals H' (T") and the norm ||'||H1§W(r) is the
usual H' (T')-norm.

Some properties of the H}fw (T')- and the H! (I")-norms are stated in the next
lemma.

Lemma 4.1.49. (a) Lett > 1. For any ¢ € H' (T'), we have

Wl g,y = 1V ae @ -

(b) Lets > 0. Let t denote a finite index set and let {v; : i € (} be a set of functions
in HS (). If the supports w; := suppv; satisfy

lwi Nwj| =0 Vi, jeuwithi # j,

then

2
Qi

i€l

5
=32 illEsa)-

Hs(@T) i€t

Proof. Part a: Lett € Ny. Then

2
1By = 2 10 Bgery = W00y

I';eC

Fort € R>9\Np, letr = |¢| + A with A € ]0, 1[. We employ (2.85) to obtain

2
Wl = D Walzaey + D [ |V (Xi y“ﬁg)l dssds,

lerl <L) MR
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_ 2
= Y Wl + X [ e,

riec |lal=l) lel<1z) CTixTi X =yl
2
=Y Wik, -
F,‘EC

Part b: The proof of Part b is as in [91, Satz 3.26]. First, we will consider the
case s € |0, 1[. We write

V=Zv,~, D; := suppv;, D:=UD,~=suppv

i€L i€t

and introduce the shorthand

[ [,

for any measurable subsets I/, T C T and w € H* (T").
Foranyi € ¢, we get

[/[w1§=/ / [v,-]§+2// [v,-]§+/ / P2
rJr D; JD; D; JT\D; r\D; JT\D;
——
=0
- / / il + 2 / i ()2 [ Ix— I dsydsy. (487)
D; JD; D; I'\D;

On the other hand,

Pt~ oo Ll
S B ff en

LEL LEL

and

[ =], ), S,
D; I‘\D,- I'\D; Y||
1
o H)z(/ _ds)dsx
ro U, Ix—y>t>

=J;
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1
+ 2/ v (y)|? — — dsyds
p; ——Jr\p; [x —y|2t

=lv; WP

A RO R

Inserting this into (4.88) results in

=] Lot o)) [0

1EL

215

(4.89)

Next, we will investigate the sum over the quantities J;. Let y; denote the

characteristic function for I"\ D;. Then

1
ZJ, Z[\ l|v( )2 (fD —”X_y||2+2sdsy) d sy

i€l 1EL

- Z[ Xi (X)|V(X)| (/D mdsy) d sy

LEL

= [ woor (Zx,( ) / 2+stsy)dsx.

LEL

=:f(x)

(4.90)

o
Let j € ¢ and let x be an interior point of D;,i.e.,x € D ;. Foranyi € t, we have

Lo flifxeD\Di| _ . .
X’(X)'_{o ifx € D; }—(1 8i.5)

o
Forx € D; we have

£ = Z[

iel\{j} ||X—Y||

Inserting this into (4.90) results in

1
2) Ji=) 2 / v () (/D\Dj sty)dsx

i€l JEtL
|VJ (X)|

(487)2/[ vj

JEu

1
———-dsy = [ —————ds,.
o on2+2s D\D; ||X _ y||2+ZS y

(4.91)
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It remains to estimate the second term in (4.89). We have

[ u = e ([ o ) s

1
= Z[ v (x)[* (/F\D sty) d sy

i€l
=|v; (X)|

1
<§:/ M()l(ﬁwfﬂtEFzﬁmod&

1EL

(W”Z//m. (4.92)

LEL

The combination of (4.89), (4.91), and (4.92) leads to

[ o

LEL

Because the L2 (I')-norm is additive we obtain

v i :||v||§2(r)+/rfr[v] <> villZa + 2 Z//[Vlz

i€t Hs(@) i€t €L

5
= 5 Z ||Vi ||%{S‘(I‘) .

i€l

The proof for s € R.1\N can be carried out in the same way. Note that the
expression [v]; has to be replaced by [v,], where vy is defined as in (2.86). |

Proposition 4.1.50. Let " be piecewise smooth and let G be a surface mesh of T':

(a) Let' ¢ € H; ! (D) for some t > 1. Then there exists a continuous interpolation
Ig Poe Sg > 6 with

lp =12 @llasay < Chg™ P gl ge oy, s €401}, (493)

where the constant C depends only on p and on the constant kg from Defini-
tion 4.1.12, which describes the shape-regularity of the mesh.

(b) Let 0 < s <t < 1. Then there exists a continuous operator Qg : H' (I') —
S‘!J  such that, forevery ¢ € H' (T'), we have

'Tn Sect.4.3.3, we will prove the continuous embedding H () = Co°(T) fort > 1 and
piecewise smooth Lipschitz surfaces.
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le — Qgollgsay = Chf;_s ol ey -

The operator Qg is stable for 0 < s <1

196l grsrymsay < C.

The proof of Proposition 4.1.50 is postponed to Sect. 4.3.5.
With Proposition 4.1.50 we can now derive quantitative error estimates from the
quasi-optimality (4.84) of the Galerkin solution @g.

Theorem 4.1.51. Let " be a piecewise smooth Lipschitz surface. Furthermore, let
G be a regular surface mesh on T'. Let ¢ € H;W(F) with t > 1/2. Then we have for

the Galerkin approximation ¢s € Sé 0 of (4.65) the error estimate

le = @sllmizmyx < CH™ P72 o) g ), (4.94)

where the constant C depends only on p and, via the constant kg from Defini-
tion 4.1.12, on the shape-regularity of the mesh.

Proof.

Case l:t = 1/2.

For ¢ € HY2(I")/K it follows from (4.84) that by choosing s = 0 we obtain
the boundedness of the error [[¢ — ¢s|l g1/2¢ryx bY (1011 /7) @l gr1/2(ry k- This
yields (4.94) fort = 1/2.

Case 2:t > 1.
Now let g € HY () witht > 1. Let T : H] () — Sgp’o be defined by

rr._ | Qgift=1
N VA

Proposition 4.1.50 implies that Tg‘!J is continuous. The estimate

2] 121
le —esllazeyx < 7||§0 — T ollgi2ayx < 7||<P — T ollgi/2r
follows from the quasi-optimality (4.84), and we have used [|¢|lg1/2(ryx =
min llg = cll1/20) = [0l a2y
If we apply Proposition 2.1.65 with Xo = L2(T"), X; = H!(I') and 6 = 1/2
we obtain the interpolation inequality

2
||<P||H1/2(r) <lellzay lell @) -

With this and with Proposition 4.1.50 it follows for # > 1 that
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lo =T 13120y = C lo =Tl 2 le = T4 ¢l ()
< Cthin(t,p-i-l)—l”(p”iIt @ (4.95)
pw

and therefore we have (4.94) for¢t > 1.

Case3:1/2 <t <.
In this case we prove (4.94) by interpolation. We have for the operator / — Qg the
estimate [cf. Proposition 4.1.50(b)]

11— Qgllar2@ynizmr < C, 11 = Qgll g2y riy < C h'2

As in the proof of Theorem 4.1.33, the estimate

_1
(I = 00l g2y < CH' 2 gl g (ry.-

follows for 1/2 < ¢t < 1 by interpolation of the linear operator / — Qg: H'(I') —
H? (T") (see Proposition 2.1.62). O

4.1.10 Model Problem 3: Mixed Boundary Value Problem*

We consider the mixed boundary value problem for the Laplace operator:
Au=0 inQ", u=gp onlp, du/on =gy only (4.96)

for given boundary data gp € H'/?(I'p), gy € H~'/?(T’,). For the associated
variational formulation we refer to Sect.2.9.2.3. The approach that allows the dis-
cretization of mixed boundary value problems by means of the Galerkin boundary
element method is due to [220, 239]. For the treatment of problems with more
general transmission conditions we refer to [233].

The problem can be reduced to an integral equation for the pair of densities
(¢.0) e H= H™'/2(I'p) x H'/2 (I'y). The solution of (4.96) can be represented
with the help of Green’s representation formula

u(x) = (So)(x) — (De)(x),  xeQ.

The variational formulation of the boundary integral equation reads [see (3.89)]:
Find (¢, 0) € H such that

bmixed ((i) (Z)) = (gD . Mr2rp) + (€N K)2(Ty) V(n.x) €H
4.97)

* This section should be read as a complement to the core material of this book.
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with

¢ n
bmixed ((o)’ <K>> = (Vpp@. M r2rp) — (KpNO. M) 121 ) + (KD K)LZ([‘N)
+ (WNNU, K)L2(FN)'

The boundary element discretization is achieved by a combination of different
boundary element spaces on the pieces I'p, I'y. For this let Gp, Gy be surface
meshes of I'p, 'y, while we assume that Gy is regular (see Definition 4.1.4). We
use discontinuous boundary elements of order p; > 0 on I'p. The inclusion

sg~t ¢ HY2(Ip). (4.98)

results, because the zero extension ¥* of every function ¥ € Sgll)’_l satisfies the
inclusion y* € L2(T") C H_1/2(£) and thus we have ¢ € H1/? (Tp).
For the approximation of o € H'/2(T'y) we define for p, > 1

,0 ,0 .
Sp0 = {n € S22 ylyr, = 0} (4.99)

and therefore the boundary values of the functions n € S 5}%}’00 vanish on 9Ty .

Remark 4.1.52. The zero extension o* of functions o € Sé’,’\?,o satisfies 0* €
Sg’o C Hl/z(I‘), where we have set G := Gp U Gp.

With these spaces we can finally formulate the boundary element discretization
of (4.97). In the following we will summarize the polynomial orders p; > 0 and
p2 > 1lin the vector p = (p1, p2).

Find (¢s,05) € SP .= Sé’L‘)’_l X 55,%,’,00 such that

bmixed ((f/)s) . (ns )) = (gp:18) 2T (&N ks)2ryy  Y(ns.ks) € SP.

os Ks

(4.100)

The norm for functions (¢,0) € His given by ||(¢.0) |y = ll¢llg-1/2¢,) +

loll g1 /2(ry)- Once more the unique solvability of the boundary element dis-

cretization of the integral equation follows from the H-ellipticity (3.112) of the

bilinear form b,,;xeq, and from the Galerkin orthogonality of the error, we have
the quasi-optimality.

Theorem 4.1.53. Let (¢,0) € H be the exact solution of (4.97). The discretization
(4.100) has a unique solution (¢s,os) € SP, p = (p1, p2), which converges quasi-
optimally:

[(¢.0) = (¢s.05)lg = C1, min_ [[(¢,0) = (n.6) || - (4.1012)
(n,k)eSP
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If the exact solution satisfies (¢,0) € H};‘W (I'p) x H}fw (Tn) for s,t > 0 we have
the quantitative estimate

i 1
6. 0) = (gs.09) s = Ca (AP0 L gl g 1)
i _1
L+ pminte,pat 1) 2||a||H;W(FN)). (4.101b)
Here the constant Cy depends only on Ci in (4.101a), the shape-regularity (see

Definition 4.1.12) of the surface meshes Gp, Gy and the polynomial degrees py
and p».

Proof. For the proof we only need to show the approximation property on the bound-
ary pieces I'p and I'y. Here we use (4.59) on I'p and (4.93) on I'y for a sufficiently
large + > 1. Hence the interpolation / é’ @ in (4.93) is well defined and we have
elory = 1 gp (p| oy = 0. Therefore the zero extension of the difference function

satisfies (¢ — IZ¢)" € H'/?(I") and from (4.93) with s = 0, 1 we have:

* .
e =18¢)" ll2y = o = 1§0ll2ryy < CH™ P Dol g oy

* 1 —_
e =18¢)" a1y = lo = 180l 1y < CH™ P ol g o).

(4.102)
Then, by interpolation as in the proof of Theorem 4.1.51 and by the boundedness of
the Galerkin projection (see Remark 4.1.27), (4.101b) follows. O

4.1.11 Model Problem 4: Screen Problems™

In this section we will discuss the Galerkin boundary element method for the screen
problem from Sect. 3.5.3, which is due to [219].

Hence we again assume that an open manifold Iy is given, which can be extended
to a closed Lipschitz surface T in R? in such a way that we have for I'S = I'\T

I =Ty UTY.

In order to avoid technical difficulties, we require that I'g and I'§ be simply con-
nected. We have already introduced the integral equations for the Dirichlet and
Neumann screen problems in Sect. 3.5.3:

Dirichlet Screen Problem: For a given gp € HY?(Ty) find ¢ € ﬁ_l/z(Fo) such
that

Vo. M2y = (€D M2y ¥n € H2(To). (4.103)

* This section should be read as a complement to the core material of this book.
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Neumann Screen Problem: For a given gy € H™1/2(Ty) find o € H? (o) such
that

(Wo,i) 12y = (8N +K) 12(ry) Yk € H'Y2(Ty). (4.104)

The Galerkin BEM for (4.103) and (4.104) are based on a regular mesh G of
I'p and a boundary element space of polynomial degree p; > 0 for the Dirichlet
problem (4.103) and p, > 1 for the Neumann problem (4.104).

Dirichlet Screen Problem: For a given gp € H/2(I'y) find g5 € Sé’l ! such that

(Vs ns) 2wy = (€p.1s) 12y ¥ns € SEV71 (4.105)

Neumann Screen Problem: For a given gy € H~Y2(Iy) find os € Sé’fo’o such that
(Wos.ks)r2wo) = (8K 2y VK € S53°. (4.106)

Note that in Sé’ 2:0 the boundary data of s on 9Ty is set to zero (see Remark 4.1.52).
With the ellipticity from Theorem 3.5.9 we immediately have the quasi-optimality
of the discretization.

Theorem 4.1.54. Equations (3.116), (3.117) as well as (4.105), (4.106) have a
unique solution and the Galerkin solutions converge quasi-optimally:

IY — s ||1§71/2(r0) =C min . ¥ —ns ||1§71/2(r0)v (4.107a)
nSeSé)l'

o — 05”1?1/2(1“0) <C miBZAO o — KS||1§1/2(F0)~ (4.107b)
Ksesg'()

If the exact solution of the Dirichlet problem (3.116) is contained in Hj, (T'o) for
an s > 0 we have

min 1
”w —Ys ”1—7—%({‘0) <Cih (s,p1+D+5 ”W”HSW(F())' (4.108a)

If the exact solution of the Neumann problem is contained in H;W (Ty) forat > 1/2
we have

: _1
lo = osll g1y < C2h™CP2+072 o gy (). (4.108b)

Here the constants Cy, Cy depend only on the respective constant C in (4.107), the
shape-regularity (see Definition 4.1.12) of the mesh and the polynomial degrees p;
and p;.

Remark 4.1.55. In general, the exact solutions of the screen problems have edge
singularities and therefore they do not have a very high order of regularity s or
t in (4.108). Therefore the convergence rates of the Galerkin solutions in (4.108)
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are low, even for higher order discretizations. This problem can be overcome by an
anisotropic mesh refinement near 01'y. For details we refer to [221].

4.2 Convergence of Abstract Galerkin Methods

All boundary integral operators in Chap. 4.1 were elliptic, which allowed the use
of the Lax—Milgram lemma to prove existence and uniqueness. As we have already
seen with the Helmholtz problem, however, in certain practical cases we encounter
indefinite boundary integral operators. Here we will show for very general subspaces
and especially for non-symmetric and non-elliptic sesquilinear forms, under which
circumstances the Galerkin solution ug € S exists and the error converges quasi-
optimally. An early study on this subject can be found in [223]. For a study on the
convergence of general boundary element methods we refer to [215].

4.2.1 Abstract Variational Problem

We would first like to recall the abstract framework from Sect. 2.1.6 and, again, refer,
e.g., to [9, Chap. 5], [151, 166, 174] as standard references and additional material.

Let H;, H, be Hilbert spaces and a(-,-) : Hy x Hy — C a continuous
sesquilinear form:

_ |a(u,v)|
lal = sup  sup ————— <00, (4.109)

ueH\(0} vero\(o3 [l a1y 1V 11y

and let the (continuous) inf—sup conditions hold: There exists a constant y > 0 such
that

, la(u, v)|

inf — >y >0, (4.110a)
ue Hi\{0} ye o\ (o3 lull &y (V]| Ea
and we have
Vv e Hp\{0}: sup |a(u,v)| > 0. (4.110b)
ueHy

Then for every functional F € H) the problem

Findu € H; : a(u,v) = F®v) Vv e H, (4.111)

has a unique solution, which satisfies

1
lullery = =1 F - 4.112)
Y



4.2 Convergence of Abstract Galerkin Methods 223

4.2.2 Galerkin Approximation

We require the following construction of approximating subspaces for the definition
of the Galerkin method, which we use to solve (4.111).

Fori = 1,2, let (S é) LeN be given sequences of finite-dimensional, nested
subspaces of H; whose union is dense in H;

-
i 1

VE=0:5,C S}y, dimSj<oco and |J,_ S " =H. i=12
(4.113)
and whose respective dimensions satisfy the conditions
— dim Sl — qim $2 .
N¢:=dimS; =dimS; < oo, YL € N : Ny < N4y, 4.114)

Ny — oo forf — oo.

Since the dimensions of S el and S £2 are equal, it follows that the system matrix for
the boundary element method is square.
The density implies the approximation property

Yu; € H; : Jim min{[lu; —v]m; v e Siy=o0. (4.115)
—>00

Every u; in H; can thus be approximated by a sequence VZ €S lf In Sect. 4.1 we
have already encountered the spaces S é’ % and S 5 "~!_ and one obtains a sequence of
boundary element spaces by, for example, successively refining an initially coarse
mesh Gy.

With the subspaces (S})
by: Findu; € S 61 such that

teny C Hi the Galerkin discretization of (4.111) is given

a(ug,ve) = F(vg)  Vvg e S, (4.116)
A solution of (4.116) is called a Galerkin solution. The existence and uniqueness
of the Galerkin solution is proven in the following theorem.

Theorem 4.2.1. (i) For every functional F € H), (4.116) has a unique solution
ug € S el if the discrete inf-sup condition

inf _la@wl 4.117)
ueS}\{0} veS2\{0} lleell &1y V]| 22,
holds with a stability constant yy > 0 and if
Vv e S\ {0} : sup |a(u,v)| > 0 (4.118)

1
uesS,

is satisfied.
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(ii) For all £ let (4.118) and (4.117) be satisfied with y; > 0. Then the sequence

(ug)y C Hy of Galerkin solutions satisfies the error estimate

lu—uella, < (1 + ”;l—”) min |ju — V|| H, . (4.119)
12

vesS l}
Proof. Statement (i) follows from Theorem 2.1.44.

For (ii): The difference between (4.116) and (4.111) with S 62 C H,; yields the
Galerkin orthogonality of the error:

a(u—ug,v) =0 YveS;. (4.120)

Owing to the discrete inf—sup condition (4.117) we have

|aue, v)| |F ()]

velluellg, < sup ———— = su
ves2vioy VIl ves2vioy 1Vl
Fo)| _ la(u.v)|

< llall Nullz, -

vemo\0} IVIH  vem\foy VI HS

This means that the statement Qyu := uy defines a linear mapping Q; : H; — S el
with || Q¢ll g, «<H, =< |la||/ye. Forallw € Sel C H; it follows from (4.117) and
(4.120) that we have the estimate

1 la(w — Qew, V)|
Iw—Qwllag, =< — sup —————— =0,
Y veS2\{0} ||V||H2
from which we have the projection property:
Yw e Sel : Qw = w.
It then follows forallw € S 61 C H, that
lu—uell ey, < llu—wla, + lw— Qeulln,
= llu—wlla, +11Q¢w—wlm,
llal
s\1+—) lu—wla,.
Ve
Sincew € S Zl was arbitrary, we have proven (4.119). O

Remark 4.2.2. (i) The Galerkin method (4.116) is called uniformly stable if there
exists a constant y > 0 that is independent of £ such that y; > y > 0. In this
case (4.119) implies the quasi-optimal convergence of the Galerkin solution.
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(ii) The subspaces S el and S ez contain different functions: S el serves to approximate
the solution and guarantees the consistency, while S [2 guarantees the stability,
because of the discrete inf-sup condition [which is equivalent to (4.117)]

|a(u,v)|

sty M,

YueS}: >y |lull g,y - (4.121)

Remark 4.2.3. In Sect. 4.1 we have seen that for the integral equations for the
Laplace problem we can always choose S 61 =S [2. The same property holds for
the integral equation formulation of the Helmholtz equation.

Remark 4.2.4. Equations (4.117) and (4.118) are equivalent to the conditions

inf _la@ 4.122)
veSP\(0} yes\joy 1l ey IVIlE
with y; > 0 and
Vue SN0} sup |a(u,v)| > 0. (4.123)

2
veS)

Remark 4.2.5. For Hy = H, = H and Sl1 = SZ2 = Sy, (4.117) implies the
condition (4.122) with y; = y; and vice-versa.

The Galerkin method (4.116) is equivalent to a linear system of equations. To see

-\ Ne .
this we need to choose bases (bj) o of S, i=12

Jj=1
Sel = span{bjl- T j=1,...,Ng}, Sez = span{bf j=1,..., N}

Therefore every u € S el andveS ez has a unique basis representation

Ny Ny
w=Yy ubj.  vg=Y_ ;b3 (4.124)
Jj=1 j=1

If we insert (4.124) into (4.116) we obtain:
Vv e Slz ca(u,v)— F(v) =0 =
N N
vv= ()0 e CVr S5 [ weatl b~ Fb2) | =0 =
=1 k=1
K/u = Fy, (4.125)

. . N,
where the matrix K¢ and the vectors u, Fy are given by u = (u j)jil and
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(Ko) i = (b}, b?

5 1 <j,k <Ny

(Feo); = F(b3)
The linear system of equations in (4.125) is the basis representation of (4.116). In
engineering literature the system matrix Ky is also called the stiffness matrix of the
Galerkin method (4.116) and the vector F; on the right-hand side is called the load
vector.

Proposition 4.2.6. The stiffness matrix Ky in (4.125) is non-singular if and only if
we have (4.121) with y; > 0.

Proof. Let Ky be singular. Then there exists a vector u = (u J')?,il e CNe\ {0}

N . .
with Kgu = 0. Since <b1> is a basis of S, ! we have for the associated function

j=1
u = _1 ujb1 # 0. It follows from (4.125) that a(uy, vg) = 0 for all vy € S2
This is a contradlctlon to (4.121) with y; > 0.
The inverse statement is proven in the same way. O

4.2.3 Compact Perturbations

Boundary integral operators often appear in the form
A+Tu=F (4.126)

with a principal part A € L(H, H') for which the associated sesquilinear form
a(-,+): Hx H — C satisfies the inf-sup conditions

|a(u,v)|

Al vl o, (4.127)
ueH\(0} e r\toy llull o [V

Vv e H\{0}: sup la(u,v)| >0 (4.128)
ueH

and a compact operator 7 € L(H, H'). Lett : H x H — C be the sesquilinear
form that is associated with 7. The variational formulation:
Find u € H such that

a(u,v) +t(u,v) = F(v) Vve H (4.129)
is equivalent to (4.126).

The discretization of the variational problem (4.129) is based on a dense sequence
of finite-dimensional subspaces (Sg) e in H:
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For a given F € H' find uy € Sy such that
a(ug,ve) + t(ug,ve) = F(vy) Vv € Sy. (4.130)

The following theorem states that the inf—sup condition for the principal part of the
sesquilinear form together with the injectivity of the operator A + 7' ensure well
posedness of the continuous problem. Furthermore, the discrete inf—sup conditions
for a dense sequence of subspaces imply (a) the well-posedness of the discrete prob-
lem, (b) the unique solvability of the continuous problem, and (c) the convergence
of the Galerkin solutions to the continuous solution.

Theorem 4.2.7. Let (4.127) and (4.128) hold, let T € L(H, H') be compact and
A + T injective,
A4+ THu=0=u=0. 4.131)

Then problem (4.126) has a unique solution u € H for every F € H'.
Furthermore, let (S¢), be a dense sequence of finite-dimensional subspaces in H

and t (-, ) the sesquilinear form associated with the compact operator T. We assume

that there exist an £y > 0 and a 'y > 0 such that for all £ > L the discrete inf-sup

conditions
la(ug, ve) + 1(ug, ve)|

inf sup >y (4.132a)
eSO} ypeso\toy  Nuella llvella
and
. a(ug,vy) +t(ug,v
inf  sup |aug, vo) + (e, vo)| >y (4.132b)
e €S0} ypeso\toy  Nuella lvella

are satisfied uniformly with respect to £. Then we have:

(i) Forall F € H' and all { > £y the Galerkin equations (4.130) have a unique
solution uy.

(ii) The Galerkin solutions ug converge for £ — oo to the unique solution u € H of
the problem (4.126) and satisfy the quasi-optimal error estimate

lu—uellg < C min{|ju—ve|g :ve € Se}, L=

with a constant C > 0 which is independent of L.

Proof. As a (-, -) satisfies the inf—sup conditions, the associated operator A : H—H'
is an isomorphism with || A|| g g < ¥~ ! [see (2.38)]. Hence (4.126) is equivalent
to the Fredholm equation

(I+A'T)u=4a7"f

with the compact operator A™'T : H — H (see Lemma 2.1.29). By (4.131), —1
is not an eigenvalue of A7!T and, from the Fredholm alternative (Theorem 2.1.36),
I + A7'T is an isomorphism ||/ + A7'T||,, ., < C. This yields the unique
solvability of (4.126) and the continuous dependence on the data.
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of (i): Theorem 2.1.44 implies both (i) and the fact that the Galerkin solution
depends continuously on the data:

1
el < " IE - (4.133)

of (ii): Let
b(u,v) :=a(u,v) + t(u,v).
Because of (4.133) the sequence (u¢), of Galerkin solutions is uniformly bounded
in H. Theorem 2.1.26 thus guarantees the existence of a subsequence uy, — u € H
that converges weakly in H (in the following we will again denote this sequence by
ug). We will now show that, with this limit «, b(u,v) = F(v) forall v € H. For an
arbitrary v € H, Pyv € Sy denotes the orthogonal projection:

Yweg € Sg: (v— Pyv,we)g = 0.
Then we have

|b(u,v) — F()| < |b(u,v) — b(ug,v)| + |b(ug, v) — b(ug, Pyv)|

T T>
+ [b(ug, Pev) — F(Pev)| + |F(Pev) — F(v)|.
T3 Ty
Forafixedve H
b(,v): H—>C

defines a continuous functional in H’. The definition of weak convergence then
yields the convergence of T; to 0 for £ — oo.

Since US ¢ is dense in H, according to the conditions, we consequently have the

¢
consistency of the discretization sequence

{—
lu— Poully = inf [lu—velly — 0. (4.134)
ve€Sy
Thus we have for T4
{—00
\Tal = |F (v=Pw)| < [Fllg v—-Pevllg — 0.
Since (ug), is uniformly bounded, we have

IT2| < (Allg'<m + T lH<8) lule |Iv— Pevla,
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and the consistency again implies that 7, — 0 for £ — oo. Finally, we have 75 = 0
since b(ug,vg) = F(vy) for all vy € Sy. Therefore u is a solution of (4.126). By
(4.131), u is unique.
We have thus shown the unique solvability of Problem (4.126) in H.
By (4.132), b(-,-) satisfies the conditions of Theorem 4.2.1 for £ > £y, from
which we obtain the quasi-optimality.
a

Remark 4.2.8. Theorem 4.2.7 only holds if the discrete inf-sup conditions (4.132)
are satisfied. In general, the discrete inf-sup conditions do not follow from the den-
sity of (S¢)y in H combined with (4.127) and (4.128). Instead, they have to be
verified for each specific problem.

In applications concerning boundary integral equations we often encounter the
following special case of Theorem 4.2.7.

Theorem 4.2.9. Let H be a Hilbert space and (S¢), a dense sequence of finite-
dimensional subspaces in H. We assume that for the sesquilinear forms a (-, ) and
t (-, ) of the variational problem (4.129) we have

(i) a(-,-) satisfies the ellipticity condition (2.44), i.e., there exists a constant a > 0
such that
Yue H: la(u, u)| > ollul|3. (4.135)

(ii) The operator T € L(H, H') that is associated with the sesquilinear form
t(,) : Hx H— C is compact.
(iii) We assume that, for F = 0, (4.129) only has the trivial solution:

Vv e H\{0}: a(u,v) +t(u,v) =0=u=0. (4.136)

Then the variational problem (4.129) has a unique solution u € H for every
FeH.

There exists a constant £y > 0 such that for all L > £y the Galerkin equations
(4.130) have a unique solutionuy € Sy. The sequence (ug), of the Galerkin solutions
converges to u and, for £ > Ly, satisfies the quasi-optimal error estimate

lu —uellg < C min ||u—ve||lg (4.137)
ve€Sy

with a constant C which is independent of {.

Proof. The H -ellipticity of a (-, -) implies the inf-sup condition (4.127), (4.128), and
therefore the unique solvability of (4.129) follows from Theorem 4.2.7.

Now we will turn our attention to the Galerkin equations and prove the inf-sup
condition for a sufficiently large £.

Weseth (-,-) = a(-,-) +1 (-,-) and define the associated operators B : H — H’
and By : S¢ — S, by
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YuveH:(Bu Vg g :=b(u,v) and
Y oug,ve €Sy (B[vaf)séxse = b(u[,V[) .

The norm of Byuy € S is given by

b (ug, ve)|
[ Beuells; = sup ———
ve€Se\{0} ”Ve“H

and the discrete inf-sup condition (4.132a) is equivalent to
VYug € S¢ with [lug||y = 1 we have: 3¢y > 0 s.t. ||B(M[||Sé >y VL= 4.

We will prove this statement by contradiction by using the conditions given in the
theorem. For this we assume:

I (We)geny With wg € Spand ||we||g =1 such that: ||ngz||sé —0 for{ — oo.
(4.138)
As (wg), is bounded in H there exists, according to Theorem 2.1.26, a weakly
convergent subsequence (which we again denote by (w¢),) such thatw, — w € H.
For all v € H, b (-,v) defines a continuous, linear functional on H and so we
have
Yve H :b(wg,v) > b(w,v) forl — oco.

It follows that

b N b ’
|Bw| g = sup M = sup lim M (4.139)
vem\ioy IVlm  vemvor oo IVIE

In the following we will estimate the numerator on the right-hand side and for this
purpose we use the decomposition

b (wg,v) = b (wg,ve) + b (we,v—1vy) (4.140)

with the H -orthogonal projection vy = Pyv € S;. From assumption (4.138) we
have

{—o00
b we.vol < | Bewellsy vellm < 1 Bewells; IIVIlg = 0.
The fact that the spaces Sy are dense in H yields for the second term in (4.140)
{—o00
b we,v—vo)l < bl Iwellgg v —vellg = I1BII IV —vellg — 0.
Hence for all v € H we have the convergence limy_, o, b (wg,v) = 0 and from

(4.139) we have Bw = 0, which, combined with the injectivity of (4.136), finally
givesus w = 0.
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We will now show the strong convergence wy — w and begin with the estimate

allw—well7 < la (w—we.w—wp)| = |a (w—we,w) —a(w,we) +a(we. wp)l .

(4.141)
Since T is compact, there exists a subsequence (which we again denote by (W¢)gen)
such that Twy — Twin H’. This can be written in the form

)4
sup |t (we,v) —t (wov)] =1 80— 0,
veH
vl =1
from which we deduce by using |w¢| z = 1 that
{—o00

|t (we, we) —t (w,wp)| <8¢ |lwellg =8¢ — 0.

This result, combined with assumption (4.138), yields

{—o0
0 <« |b(wg,we)| = la(we,we) +t (weg,we)| < |a (wg,we) +t (W, we)| + 8¢,
in other words:

a(we,weg) = —t (w,wg) + 8¢ with  lim 8§ = 0. (4.142)
L—o00
If we insert this into (4.141) we obtain
allw—wel% < |a(w—wgw) —b (w,wy) + 8| .

The first two terms on the right-hand side are equal to zero because of w = 0. We
also determined limy_,¢ §¢ = 0 in (4.142) so that we have proven wg — w = 0.
This, however, is a contradiction to the assumption that ||wg| z = 1.

Condition (4.132b) can be proven similarly.

The solvability of the Galerkin equation for £ > £ and the error estimate (4.137)
then follow from Theorem 4.2.7. O

4.2.4 Consistent Perturbations: Strang’s Lemma

In this section we will consider variational formulations of boundary integral equa-
tions of abstract form:
Find u € H such that

b(u,v) = F(v) Vve H (4.143)

with F € H'.
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In general we assume that the sesquilinear form b (-, -) is continuous and injective
and that it satisfies a Garding inequality.

Continuity:
Yu,ve H: |b(u,v)| < CpllullgIvilg - (4.144)

Gadrding Inequality:
Vue H :|b@u)+ (Tu,u)pgp| = allulz (4.145)

with @ > 0 and a compact operator T € L (H, H').

Injectivity:

Vve H\{0}: b(u,v) =0= u =0. (4.146)
Conditions (4.144)—(4.146) yield the prerequisites (i)—(iii) from Theorem 4.2.9 with
t(,) == —(T-,)gxg and a := b — t. From Theorem 4.2.9 we derive the

unique solvability of (4.143) as well as the stability (and thus the quasi-optimal
convergence) of the Galerkin method as follows. For a dense sequence of finite-
dimensional boundary element spaces (S¢), in H there exists some £y > 0 such
that for all £ > £, the discrete inf—sup conditions

, |b(u,v)|
m TR
weS\MO} ves \toy llullm [VIa

, |b(u,v)|
inf TR
veSe\0} ues oy lullm [vIa

>y>0
4.147)
>y>0

hold, while y > 0 is independent of £. The Galerkin equations
Findug € Sy : b(ug,v) = F(v) Vves, (4.148)
are, by Theorem 4.2.7, uniquely solvable for £ > £y and we have

lu —ugllg < C min ||lu—v|g. (4.149)
veSy

In practical implementations of the Galerkin boundary element method in the form
of a computer program it is usually not possible to realize the exact sesquilinear
form b (-, -). Instead, one usually uses an approximative sesquilinear form by(-, -).
Reasons for this are:

(a) The approximation of the system matrix by means of numerical integration

(b) The use of compressed, approximative representations of the Galerkin equations
with cluster or wavelet methods,

(c) The approximation of the exact boundary I' by means of, for example a
polyhedral surface.
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The perturbation of the sesquilinear form b (-, -) as well as the functional F leads
to the perturbed Galerkin method:

Find 1y € Sy such that
b[(ﬁg, V) = Fg(\/) Vv e S[. (4.150)

For the algorithmic realization of boundary element methods, one of the essential
aims is to define the approximations (4.150) in such a way that the solutions i,
exist, converge quasi-optimally and — in comparison with the computation of the
exact Galerkin solution — can be calculated reasonably rapidly and with little use of
computational memory. A sufficient condition in this respect is that the difference
be(-,)—b(-,-) is “sufficiently small”. We will specify this statement in the following.

For the Galerkin discretization we will generally assume in the following that
we have chosen a dense sequence (S¢), C H of subspaces of dimension N, :=
dim Sy < oo which satisfies (4.114).

Let sesquilinear forms by : Sy x S¢ — C be defined for all £ € N. These are
uniformly continuous if there exists a constant C; which is independent of £ such
that "

be (e, ve)l = Cp lluel g vell g Yug, vg € Sy. (4.151)

The forms by satisfy the stability condition if there exists a null sequence (¢¢)pen
such that

|b(ug,ve) — beug, vo)| < celluella vellm  Vue,ve € Se. (4.152)

The stability condition will imply the existence of a unique solution of the perturbed
Galerkin equations for a sufficiently large £ (see Theorem 4.2.11).

For the error estimate of the perturbed Galerkin solution we may measure
the function uy on the right-hand side in (4.152) in a stronger norm (see Theo-
rem 4.2.11). In this context ||-||;; : S¢ — Rx¢ defines a stronger norm on Sy if there
exists a constant C > 0 independent of £ such that

lullg = Clluly  Vu e Se
The perturbed sesquilinear forms by : Sy x Sy — C satisfy the consistency con-
dition with respect to a stronger norm |-||; if there exists a zero sequence (§¢) e
such that

|b(ug, ve) — be(ug,ve)| < Sellullu velle Vug,ve € Se. (4.153)

Remark 4.2.10. (a) The stability condition and the continuity of b (-,-) imply the
uniform continuity of the sesquilinear form by (-, -).
(b) The consistency condition follows from the stability condition with §; = Ccy.
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(c) In many practical applications the use of the stronger norm |-||y; in (4.153)
permits the use of a zero sequence (8y), which converges more rapidly than in
(4.152). The convergence rate of the perturbed Galerkin solution is influenced
by (8¢), and not by (c¢),-

Theorem 4.2.11. Let the sesquilinear form b(-,-): H x H — C be continu-
ous, injective and let it satisfy a Gdrding inequality [see (4.144)—(4.146)]. Let the
stability condition (4.152) be satisfied by the approximations by.

Then the perturbed Galerkin method (4.150) is stable. That is, there exist y > 0,
Lo > 0 such that for all £ > £y the discrete inf-sup conditions

. |be(ug, ve)| -
inf —_— >,
ueeSMO} v es,\(0y uella vella
(4.154)
- |be(ug, ve)l > 7

; _1oetue, vl
ve eSO}y es,\toy luella lIvella

hold. The perturbed Galerkin equations (4.150) have a unique solution for £ > £.
Ifin addition the approximative sesquilinear forms are uniformly continuous and
satisfy the consistency condition (4.153) the solutions uy satisfy the error estimate

. F(ve) — Fe(ve)
min (|lu —wellg + S¢llwellu) +  sup —| | .
we€Sy

lu—igllg <C
v €S, \{0} [vell

(4.155)

Proof. According to the assumptions, the exact sesquilinear form b(, -) satisfies the
inf-sup conditions (4.147) as well as the stability condition (4.149). We will verify
(4.154). For this let 0 # uy € Sy C H be arbitrary. Then we have

|beue, vo)l sup (|b(ue7w)| 3 |b(ue,Vz)—bz(ue,Ve)|)
weso\oy el 7 vespvqo W vella vell
|b(ug, ve) — be(ug, ve)l
> yllugllg — sup
ngSg ”VZ”H
> (y —co) lluella- (4.156)

If we choose £9 > 0 so that ¢, < y forall £ > £y we have verified the first condition
in (4.154). The second condition can be verified in a similar way.

Combined with (4.154), it follows from Theorem 4.2.1(i) that the perturbed
Galerkin equations (4.150) have a unique solution for £ > £.

Next, we will prove the error estimate (4.155). Let uy € Sy be the exact Galerkin
solution from (4.148). For £ > £, we have, according to (4.156), the following
estimate for the perturbed Galerkin solution i, € Sy
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=ty < llu—wuelly + llue — el

|be (g — 11, ve)|

<llu—ully +(—c)™"  sup
v €S\{0} lvell &
- |be (e, ve) — Fe(ve)|
=lu—wllg + @ —c)™' sup —————-——
v €Se\{0} ”W”H
_ |be(ue, ve) = b(ug, ve)| + | F(ve) = Fe(ve)l
Su—uelly + @ —co™  sup )
ve €Se\{0} ”W”H

We consider the difference term |bg (i, v¢) — b(ug, ve)| and obtain, by using the
continuity of by and b as well as the consistency condition, for an arbitrary wy € Sy

|be(ug, ve) — blug, ve)| < |bg (g — we, ve)| + |be (We, ve) — b (we, ve)l
+ b (we — ug, ve)|
< Cyp lue —wellg Ivelg + 8¢ Iwelly Ilvell o
+ Cp [lwe — uell gy vell g -

From this we have

be(ug,ve) — b(ug, ve) .
sip | L= ¢ min (Ju—welly + 8¢ Iwell) -
v €S\ {0} [vell o weESe

With ¢, < y and the consistency condition (4.153) we finally obtain

- . 1
lu—itgllg <C min {lu—welg + ——— (lu—wellg + Selwellu  (4.157)
we€ESy Yy —C¢

ve€Se\{0} ”Ve”H

+ s | F(ve) — Fe(w)|)} ‘

O

Remark 4.2.12. In connection with the boundary integral operator V for the single
layer potential we have H = H~'/2 (T"). Since all the boundary element spaces we
have considered so far are contained in L* (T"), we can choose |||y = Il 2¢ry as
a stronger norm on Sy. The term ||wy || .21y on the right-hand side in (4.155) can be
easily estimated if the boundary integral operator is L?-regular, more specifically if
V=l HY(I') = L?(I) is continuous. Let u € L? (") be the exact solution and
wy := Ilgu the L?-orthogonal projection of u onto the boundary element space Sy.
Then we have |wellp2ry < llullp2qry < C I|F gy and, thus for a sufficiently
large L > Ly

e = digll gr-12ry < €3 = Mgl gr—1/2ry + Sell Fll gy

[F(vg) — Fy(ve)l
4+ sup ———
veeS\{0} ||V6||H—1/2(r)
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From this we can deduce how the null sequence (8y), and the consistency of the
approximation affect the right-hand side in the error estimate.

The error ||u — Tgu|| g—1/2(ry can be traced back to the approximation proper-
ties of Sg. The choice wy = Tlu yields, for an arbitrary vy € Sy

| = Teu,v) 21|

lu—eull g-1/2¢ry = sup
ve H1/2(T)\{0} VIl 12
|(u—Tleu,v— V[)Lz(p)|
= sup
veH1/2(T)\{0} IVl 12y

Now we take the infimum over all vy € Sy and obtain

lv—=vellL2r
lu— el g0y < | swp  inf ————0
veHl/z\{o}VeGSe\{O} ||V||Hl/2([*)

X ( ing ||ue _W£||L2(F)) . (4.158)
14

we €

4.2.5 Aubin-Nitsche Duality Technique

Boundary integral equations were derived with the help of the integral equation
method (direct and indirect method) for elliptic boundary value problems. In many
cases our goal thus is to find the solution of the original boundary value problem
by solving the boundary integral equation. The numerical solution of the boundary
integral equation then only represents a part of the entire process. (Note, however,
that with the direct method the boundary element method yields a quasi-optimal
approximation of the unknown Cauchy data.) More importantly, the aim is to find
the solution u of the original elliptic differential equation in the domain 2. This
solution can, as we will show here, be extracted from the Galerkin solution of the
boundary integral equations with an increased convergence rate, a fact which stems
from the representation formula.

Example 4.2.13 (Dirichlet Problem in the Interior, 2). Let Q2 C R3 be a bounded
Lipschitz domain with boundary T and given Dirichlet data gp € H'/*(T"). Find
u € HY(Q) such that

Au=0 inQQ, ulr = gp. (4.159)
The fundamental solution for the Laplace operator is given by G (z) := (4x ||Z||)_l.

The single layer potential u(x) = [ G (x—y)o(y)dsy, x € R, leads to the
boundary integral equation: Find o € H™"%(T') such that
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(Vo.m oy = (g0 M2y Vne HVA(D), (4.160)

where (-, ) 2(ry again denotes the continuous extension of the L? inner-product to
the dual pairing (-, ) g1/2(ryx H—1/2(r)-

For a subspace Sy € H™Y2(T") the Galerkin approximation o € Sy is defined
by: Find oy € Sy such that

Vo, m 2@y = (&0 M 2(r) Vn € Sg. (4.161)

Equation (4.161) has a unique solution which satisfies the quasi-optimal error
estimate

lo —U(||H—1/2(F) <C min{||0 - V||H—1/2(F), S S(}. (4.162)

We obtain the approximation of the solution u(x) of the boundary value problem
(4.159) by

ug(x) := / G (x—y)oe(y) dsy, X € Q. (4.163)
r

In this section we will derive error estimates for the pointwise error |u(x) — ug(X)|-

4.2.5.1 Errors in Functionals of the Solution

The Aubin—Nitsche technique allows us to estimate errors in the linear functionals
of the Galerkin solution. We will first introduce this method for abstract problems as
discussed in Sect. 4.2.1. The abstract variational problem reads: For a given F(-) €
H'’ find a function u € H such that

b(u,v) = F(v) Vv e H. (4.164)
Let (S¢), C H be a family of dense subspaces that satisfy the discrete inf-sup
conditions (4.117), (4.118). Then the Galerkin discretization of (4.164), i.e., find

ug € Sy such that
b(ug,ve) = F(vp) Yvg € Sy, (4.165)

has a unique solution. The error e; = u — uy satisfies the Galerkin orthogonality
b(u — Uy, V[) =0 Vg € Y] (4.166)

as well as the quasi-optimal error estimate
c .
lu—uella < ﬁmm{llu—wﬂﬂ ¢ € Si (4.167)

The Aubin—Nitsche argument estimates the error in functionals of the solution.
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Theorem 4.2.14. Let & € H' be a continuous, linear functional on the set of
solutions H of Problem (4.164) which satisfies the assumptions (4.109), (4.110).
Let uy € Sy be the Galerkin approximation from (4.165) of the solution u. Fur-
thermore, let the discrete inf-sup conditions (4.117), (4.118) be uniformly satisfied:
yezy>0.

Then we have the error estimate

& W) — G ue)| = C llu—gellallwg — Vella (4.168)
for an arbitrary ¢; € Sy, Yo € Sy, where wg is the solution of the dual problem:
Findwg € H : bw,wg) = &(w) VYwe H. (4.169)

Proof. From the continuous inf-sup conditions (4.110) Remark 2.1.45 gives us the
inf-sup conditions for the adjoint problem, from which we have the existence of a
unique solution.

Remark 4.2.4 shows that the discrete inf-sup conditions for b (-,-) induce the
discrete inf-sup conditions for the adjoint form b*(u,v) = b(v,u). Therefore the
adjoint problem (4.169) has a unique solution wg; € H for every &(-) € H'. By
virtue of Sy C H and (4.169), (4.166) it follows that

&) — S )| =16 u—up)| = b(u—ug, we)|
= |b(u—ug, wg —vy)| VYve € Sy.
The continuity (4.109) of the form b(:,-) and the error estimate (4.119) together
yield (4.168). a

The error estimate (4.168) states that linear functionals & () of the solution may
under certain circumstances converge more rapidly than the energy error ||u—uy| g .
The convergencerate is superior to the rate in the energy norm by a factor inf{|jwg —
Yellm: ve € Se}. The following example, for which & (-) represents an evaluation
of the representation formula (4.163) in the domain point x € €2, makes this fact
evident.

Example 4.2.15. With the terminology used in Example 4.2.13, for the error |u(x)—
ug(x)| we have the estimate

u(x) —ue(x)| < € min{flo — el g-1/2(ry : @2 € Se}

. (4.170)
xmln{||ve - 1//5||H—1/2(1~) TPy € S(}

with the solution v, € H™Y2(T") of the dual problem:

Find v, € H™S (I') such that

(Vvempoy = (Gx =), M2y ¥ne HVAD). (4.171)
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With Corollary 4.1.34 we deduce the convergence rate for Sy = Sglj_l

in(s,p+1)+% +min(t,p+1)+%
u) —ug(x)| < Chy PRI | s oy Vel ey (4.172)

fors,t > —% if lollms @y and ||ve | e are bounded. If we have maximal regularity,
i.e., s =t = p+ 1, the result is a doubling of the convergence rate of the Galerkin
method. For example, for piecewise constant boundary elements p = 0 and (4.172)
with s =t = 1 we obtain the estimate

() — ()| < C B0l oy Ivell a1 oy (4.173)

and, thus, third order convergence for all x € Q2. Note that the constant C tends to
infinity for dist (x, I') — 0.

Remark 4.2.16 (Regularity). Inequality (4.172) only gives a high convergence
rate if the solutions o, v, are sufficiently regular. For the boundary integral operator
V on smooth surfaces T, the property gp € HY2TS(T) with s > 0 is sufficient
so that 0 € H~'/2%5(T), and the property G(x —-) € H?>T(T) witht > 0 is
sufficient so that v, € H~Y2+t (T') (see Sect. 3.2). Then we have the estimates

0117245 ey SCONgD /25y el 17240y < CONGEA i/ ry.

(4.174)

with a constant C(-) which is independent of gp and G. Because of the smoothness

of the fundamental solution G(x — ) forx € Q,y € I we have G(x—-) € C*®(T').

On smooth surfaces this implies the estimate (4.174) for all t > 0. With this (4.172)
becomes

u(x) — ug(x)| < C1(p) Ca(x) by PFDT, (4.175)

where we have C(x) = [[ve|l g r+1(ry < C(PIGX =) go+2(r)-

Note that especially for elements of higher order, C,(x) can become very large
for x near I'. Formula (4.163) should therefore only be used for points x in the
domain that are sufficiently far away from I'. For points x which are very close
to the boundary or even lie on I', a bootstrapping algorithm has been developed to
extract the potentials and arbitrary Cauchy data and their derivatives near and up to
the boundary (see [213]).

If a quantity which has been computed or postprocessed by using the Galerkin
method converges with an order that is higher than the order of the Galerkin error
in the energy norm one speaks of superconvergence. Similar to the superconver-
gence (4.168) of functionals & (-) of the Galerkin solution ug, one can also study the
convergence of uy in norms below the energy norm.

Now let H = H*(T") be the Hilbert space for the boundary integral operator
B : H*(I') > H™5(I") of order 25 and let b(-, -) be the H* (I")-elliptic and injective
sesquilinear form associated with B:

b(u,v) = (Bu,v) 2y : H(T) x H*(T') — C.
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Here the continuous extension of the L2 (') inner-product for the dual pairing
(") ms (ryx -5 () 18 again denoted by (-, ) .2(r). Furthermore, let (S¢), be a dense
sequence of subspaces in H*(I")and let the discrete inf—sup conditions (4.117),
(4.118) hold. Then we have for¢ > 0

3 _ (v,u—ug)r2(r)
lu —uell gs—y = sup T T —
veH—s+t(T)\{0} ||V||H—s+f(r)

Let w, be a solution of the adjoint problem: Find w, € H*® (I") such that
bw,wy) = (v, W) 2(1 Ywe H*(T). (4.176)

Then with the Galerkin orthogonality (4.166) we have (transferred to the adjoint
problem)

b (u—ug,wy)
lu—wellgs—qry = sup =~ —— "
ve H—s+1(IM\{0} ”V”H*S“(F)

b (u—ug,w, —wy)

= sup
ve H—s+1(I)\{0} IVl s+ ()
wy = wellgs @
<Clu—ulpsqy  sup D

ve H—=s+1(T)\{0} IVl z7=s+1 )
Since wy € Sy was arbitrary, we obtain

wy, — W K
lu — gl grs—rqry < Cllu—ugllms) sup inf —” d ¢llas(r)

veH—s+ 0oy e€Se IV g—s+1(r)
(4.177)
For ¢t > 0 higher convergence rates are therefore possible for u; than in the H*-
norm, assuming that the adjoint problem (4.176) has the regularity

ve H*"T)=w, e H*T"(T), VO<t<T. (4.178)
In order to obtain quantitative error estimates with respect to the mesh width z, we
again consider a dense sequence of boundary element spaces (S¢), of order p on
regular meshes Gy of mesh width /y. Then the approximation property

inf ||Wv _ W(”H.S(l") S C hzlin(p-i-l,s-‘rt)—s

W o
nf woll s+

holds. These ideas are summarized in the following theorem.

Theorem 4.2.17. Let the sesquilinear form b (-,-) of problem (4.164) satisfy the
conditions (4.109), (4.110). Let the exact solution satisfy u € H" (I') with r > s.
We assume that the adjoint problem (4.176) has the regularity (4.178) with© > 0.
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Furthermore, let (S¢), be a dense sequence of boundary element spaces of order p
in H® (T") on regular meshes Gy of mesh width hy.
Then we have for the Galerkin solution uy € Sy and 0 < t <7 the error estimate

= well sy < € B PHEDHTREEDSAOTE gy (4179)

In particular, in the case of maximal regularity, i.e., forr > p+1,7 > p+1—s, it
thus follows that we have a doubling of the convergence rate of the Galerkin method:

lu —uell g2s—p—1 < C p2PD=2s llull g7 41 ()

4.2.5.2 Perturbations

The efficient numerical realization of the Galerkin BEM (4.165) involves, for exam-
ple, perturbations of the sesquilinear form b(-, -) by quadrature, surface and cluster
approximation of the operator or the functional & (+), used for the evaluation of the
representation formula at a point X € 2. Instead of (4.165) one implements a per-
turbed boundary element method:

Find 1y € Sy such that

by(itg,v) = Fy(v) VvesS, (4.180)

and instead of & (uy) one implements an approximation &/ (it¢). Here we will study
the error

G (1) — & (itg) (4.181)

of a linear functional of the solution, for example of the representation formula
(see Example 4.2.13). According to Theorem 4.2.11, (4.180) has a unique solu-
tion for a sufficiently large £ if the exact form b(., -) satisfies the discrete inf-sup
conditions

b )
inf sup _Iblue.vol >y >0,
ue eSO} ypes,\foy luellm vella (4.182)
|b(ug, ve) '

inf

B
SN yesor el el

on Sy xSy and if the perturbed form by (-, -) is uniformly continuous [see (4.151)] and
at the same time satisfies the stability and consistency conditions (4.152), (4.153).
Then for a sufficiently large £ we have the error estimate

Ju—iieln < € { min (u—well +Scwelo) + sup 00— L0l
we€Se veeSe\{0} ||V[||H
(4.183)
The perturbations of the right-hand side F and of the functional & define the
quantities
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. |Fe (ve) = F (vp)] . G (ve) = & ()]
fri= sup ————————— and g;:= sup .
v €S, \{0} vell g v €S\ {0} [vell g

(4.184)
Note that in many practical applications the perturbations Fy and & are not defined
on H but only on S;. We assume that ( f;), and (g;), are null sequences and, thus,
that there exist constants Cg and Cg such that

|G|y = Cg <oo and |Flly + fi <Cr  YLeN.

Theorem 4.2.18. Let the form b(-,-) satisfy (4.182) and let the perturbed form
be(-,-) satisfy the conditions (4.151)—(4.153). Then, for a sufficiently large {, the
error (4.181) has the estimate

- . C B C
|6 (u) — G (iie)| < Cllu—wellyr min [we — Vel + —cq [lite — ]l +—= fi
VeES) Y Y

Ce . C
+—2 min (¢ Ju—@ely + 8 loelly) + —ge.  (4.185)
Y €St 14

Proof. By the definition (4.170) of wg and the orthogonality of the Galerkin error
we have

16 (u) — & (ie)| = [b(u—iig, we)|

) (4.186)
= |b(u—ug, wg — Yo)| + |b(ug — itg, we)|

for an arbitrary ¥y € Sy. Furthermore, let W? € Sy be the solution of the Galerkin
equations
b(we.w) = b(we, we) = G(wg)  Vwg € Se.

Then, taking the Galerkin orthogonality into consideration, we have
|b(ue = itg. we)| = |blug — iig. wi)| = |b(ug, wi’) = biie. wy)|
< [FO§) = beliie, wi)| + (b = b) e, w))|
= [FO) = Few)| + (0 = be) . wi)).

We consider the difference b — b, and with the stability and consistency conditions
we obtain for an arbitrary ¢y € Sy the estimate

(b = be) @, wE) | = | (b = bo) Gie = 0o wED)| + [b (9o wf) = b (000 )|

< celie— el [wf |, +8clecy W[, - @187
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With this result and with (4.186) we obtain
|G (1) — Gitg)| < 16 (u) — & (itg)| + |G (itg) — Gy (ity)]
< b —ug.we — Yo + [(F — F)(w§)|
+1(b = be) (e, wi)| + (& — Gg) (i) (4.188)
= Cllu— el Iwe — el + fo |wE|
+ w8, ol —gella + e lecl) + ge el

According to Theorem 4.2.11, for a sufficiently large £ the sequence (it¢), of the
perturbed Galerkin solutions is stable and with £( from Theorem 4.2.11 we have

- 1 Cr
el < Y (F g+ fo) = 3 Ve > L. (4.189)
We use the discrete inf—sup conditions (4.182) to find a bound for the term H W? H H:
& |b(we. w)| |G (we)|
yiwg lle = sup ————— = <I&lw =Ces
wees\oy  wella wees oy Iwell

for £ > £,. This yields

~ C
|6 (1) — G (itg)| < Cllu—ugllg lwe — ¥ellg + TGﬂ

Ce - Cr
+ 7 (ce g — @ell g + ¢ llelly) + ng-

The triangle inequality ||ity — ¢¢|lg < |lite —ullg + |lu — ¢¢ ||y finally yields the
assertion. 0

The inequality (4.185) can be used to bound the size of the perturbations ¢y, &,
/¢ and gy in such a way that the functional & (it¢) converges with the same rate as
the functional & (uy) for the original Galerkin method.

To illustrate this we consider H = H® (I') and a discretization with piece-
wise polynomials of order p. Then the optimal convergence rate of the unperturbed
Galerkin method is given by |u — ugl|; < ChD '™

Inequality (4.183) shows that the two conditions §; < Ch} 175 and

<
C hf s imposed on the size of the perturbations guarantee that ||u — ity || <

C hf tls converges with the same rate as the unperturbed Galerkin method. The

optimal convergence rate for the dual problem is also HW@ - wzs' H . <C hf s
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and it is our aim to control the size of the perturbation in such a way that the
functional &/ (ity) converges at the rate C h?p 2

For this to hold, the perturbed sesquilinear forms, the right-hand sides and
functionals in (4.152), (4.153) and (4.184) all have to satisfy the estimates

cp < Cl’lf_H_s, 82 < Ch§p+2—2s, fZ < Ch?p+2—2s, g0 < Ch§p+2—2s.
In the following theorem we will determine a bound for the effect of perturbations
b — by and F — Fy on negative norms of the Galerkin error.

Theorem 4.2.19. Let the assumptions from Theorem 4.2.18 hold for H = H*(T'),
b: H*(T)x H® (I') — C. Furthermore, let the adjoint problem (4.176) satisfy the
regularity assumption (4.178) for a t > 0. Then for a sufficiently large { we have
the error estimate

lu — el gs—qy < C {dé,s,s+t llu = well gsqry + cellu — el gsry

+fet il (el gelsy + 3elloclo)] @190
YeESY
for0 <t <7t with
w— Yy s
dy it = sup inf % )
we H s+ (T)\{0} Ye€Se ||W||H~V+’(I‘)

Proof. Let v € H™ST(I") be arbitrary and let w, be the solution of the adjoint
problem (4.176) with the right-hand side v. We then have

(V, u— l:l()LZ(I*) =b (Lt - 17‘[7 Wv)
=bw—ug,wy) + b (ug— g, wy). (4.191)
~————
()

We consider (). Let wf € S¢ be the Galerkin approximation of wf:
b (\)g,wf) = (W, ve) L2(1) Vv € Sp.

With vy = ug—iiy € Sy it follows from the Galerkin orthogonality b (Vg, wy, — Wf) =
0 that we have the relation

(x) =b(ug —tg,w,) =b (I/l( — L?g,wf)

= (b —by) (u[ — iy, Wf) + by (W — g, Wf)



4.2 Convergence of Abstract Galerkin Methods 245
= (b—by) (uz — iy, Wf) + be (14[7 Wf) — Fy(w))
= (b—by) (uz — iy, Wf) + (bg —b) (ue, Wf) +b (ue, Wf) — Fy(w))
= (b= bo) (—ite.wt) + F(wh) = Folwh).

With this we will estimate (4.191) by using (4.166) as follows. For every ¥, € S¢
we have

|(V,M—122)L2(I‘)| = |b (M—MZ,WV—WKH

+ ‘(b —by) (,}e,wf> (4.192)

+ |F o) = Fe(w)

As in (4.187), we use the consistency condition to prove for an arbitrary ¢; € Sy
the estimate

W,

6= b wh)

(4.193)

< (et lie = oell sy + S leello) [l -

where |-||; again denotes a stronger norm than H* (T).

The regularity assumption (4.178) and the stability of the Galerkin approxima-
tions (wf) , of the adjoint problem yield forall0 < ¢ < fand allv € H~* 1 (T) the
estimate

Wil < € Iwllasay < € Vla-s@y < C Wlg-steqy.  (4.194)
Therefore it follows from (4.192) and (4.193) with (4.184) that

| (V, u— l:l()LZ(I*) |

lu — el gs—(ry = sup
ver—s+ (N0} IIVIlE=s+1 ()

VIl =5+ (1

— w, — s

=C ” 6” s sup inf M

U—uellgs) r
ve H =St (T")\{0} Ye€E€Sy

+ C inf (c¢ i — @ell gsry + 8¢ leelly) + Cfe
YeESY

The regularity assumption imposed upon the adjoint problem yields the estimate
VIl g—s+rry = C 1wy | zrs+ (ry- Hence we have

e =Yl s
sup inf ———
ver—s+im\oy \VeeSe  [Vllg—s+i(r)

. w—"Yy s
<C sup inf % =Cdy 54+
weH s+ (T)\{0} V€S, ”W”HS'H(F)
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Note that dy s, represents an approximation property of the space S¢. Combining
these results we have proved that

lu— dtel| zrs—r vy < C {d s, llu— vell sy + ce =it sy

+fe+ inf (cgllu— oell gsry + 8¢ lpelly) -
V€S
O

With the help of inequality (4.190) we can determine sufficient conditions on the
admissible magnitude of the perturbations cg, ¢, f¢ and gy so that the Galerkin error
|| — g || rs—: (ry converges with the same rate as the unperturbed Galerkin solution.

In order to illustrate this, we consider a discretization with piecewise polyno-
mials of order p and assume that the continuous solution satisfies u € HPT! (I).
Then the optimal convergence rate of the unperturbed Galerkin method is given by

+1—s+min(p+1—s).t
= sl prsery < ChE T ] i .

Inequality (4.183) shows that the two conditions §; < Ch} 175 and f

Chy 175 imposed on the size of the perturbations guarantee that ||u — it | HS(T)

IAIA

C hf s converges with the same rate as the unperturbed Galerkin method (with
respect to the H°-norm). The optimal convergence rate of the term dy 44, is
dossir < Ch?m{pﬂ_s’t} and it is our goal to control the size of the per-

turbations in such a way that the term ||u — itg|| gs— () converges at the rate

Chy Flmstmin(p 1790 Thig Jeads to the following condition for the quantities
ces 8¢, fe

C (hr;in{p+1—s,t}+p+l—s + C[l’lp-H_s + fZ + Cehp+1_s +8@>

< Ché?-i—l—s-‘rmin(p-i-l—s),t).

For this the perturbed sesquilinear form, right-hand sides and functionals in
(4.152), (4.153) and (4.184) have to satisfy the estimates

) ’

Ceich?m{p-i-l—s,t} Seich?m{p+l—s,t}+p+l—s

fZ < Chmin{p-‘rl—s,t}-i—p-‘rl—s
JL= Vi .

4.3 Proof of the Approximation Property

In Sects.4.1-4.2.5 we have seen that the Galerkin boundary element method pro-
duces approximative solutions of boundary integral equations which converge quasi-
optimally. Here we will present the proofs of the convergence rates (4.59) and (4.93)
of discontinuous and continuous boundary elements on surface meshes G with mesh
width & > 0.

In general we will assume that Assumption 4.1.6 holds, i.e., that the panel

parametrizations can be decomposed into a regular, affine mapping )(f;fﬁ“e and
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a diffeomorphism xr, independent of 7, since y, = yr o yffin. For yafine there
exist by € R? and B; € R3*? such that

X3 (%) = BeX + be.

The Gram matrix of this mapping is denoted by G, := BIB, € R>2. It is
symmetric and positive definite.

Note: The proof of the approximation property has the same structure as the
proofs for the finite element methods (see, for example, [27,33,68,115]) and is also
based on concepts such as the pullback to the reference element, the shape-regularity
and the Bramble—Hilbert lemma.

4.3.1 Approximation Properties on Plane Panels

We use the same notation as in Sect. 4.1.2. Let ['bea polyhedral surface with plane
sides and let G¥" be a surface mesh of I' which consists of plane triangles or
parallelograms. The panels 7 € G*"® are images of the reference element T under

a regular, affine transformation yfne : 7 — .

As in (4.23), for the reference element 7 and p > 0 we denote the space of
all polynomials of total degree p by PPA (%), while L; denotes the index set for the
associated unisolvent set of nodal points [see (4.70) and Theorem 4.1.39].

In preparation for Proposition 4.3.3 we will first prove a norm equivalence.

Lemma 4.3.1. Let k € N> . Then

i j
(U1 = lulggr + Z ‘u ;,;)‘ (4.195)
(i.))ed

defines a norm on H**1 (2) which is equivalent to -l 1-

Proof. The continuity of the embedding H**!' (3) — C (?) follows from the

Sobolev Embedding Theorem (see Theorem 2.5.4), and thus [-]; ;. is well defined.
Therefore there exists a constant ¢; € R~ such that

k+1
[Uk+1 < e lullgsq Yue H* ' (7).
Therefore it remains to show that there exists a constant c; € R~ such that
k+1 /~
luller1 < 2 [Ulg4q Yue H ' (7).

We prove this indirectly and for this purpose we assume that there exists a sequence
(Un)pyeny C H¥T1 (%) such that
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Vn € N : |lupllgy =1 and nli)n;o [tn]gs1 = 0. (4.196)

We deduce from Theorem 2.5.6 by induction over k that there exists a subsequence
(”"j)jeN that converges to some u € H¥ (7):

im ||u,, —u” =0.
—00 ’ k

J

The second assumption in (4.196) yields

jli)n;o |”"j - ”|k+1 = 0.
Hence u € H**1 (%) with |u;,; = 0 and we have
im i, ]y =0

Since |u|;y; = 0, we have u € Py and the Sobolev Embedding Theorem implies
the convergence in the nodal points

(@ = lim u,, (2) Vz= (l—,i), i, )) €.
joo Py

Theorem 4.1.39 therefore yields a contradiction to the first assumption in (4.196).
O

Lemma 4.3.2 (Bramble-Hilbert Lemma). Let k € Ny. Then
pienﬂ,fk lu = plles1 = c2 luleyq

for all u € H*+1 (%), with ¢, from the proof of Lemma 4.3.1.

Proof. For k = 0 the statement follows from the Poincaré inequality (see Corol-
lary 2.5.10).

In the following let k > 1 and u € H¥*+' (). Thanks to the Sobolev Embedding
Theorem the point evaluation of u is well defined. Let (b,),cx, be the vector that
contains the values of u at the nodal points: b, = u(z) forallz € ;. Let p € IP’,?
be the, according to Theorem 4.1.39, unique polynomial with b, = p (z) for all
z € Y. Then, by Lemma 4.3.1,

inf [u—qllgsr < lu—plligsr < c2[u— pleyr = c2 [ulpy -
q€Py
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Proposition 4.3.3. Let 1 : HPT1(3) — H*(%) be linear and continuous for 0 <
s < p + 1 such that R
Vg ePp(3): TIg =gq. (4.197)

Then there exists a constant ¢ = c(ﬁ) so that
Vve HPPN@) o v =Tl gscey < ¢V ot e (4.198)
Proof. Letv € HP*1(%). Then by (4.197) forall g € Pﬁ (7) we have

y—Tly = V+61—ﬁ(V+q)
v =Tvllgs@ < Ellv+gllmre
¢ = I — Ollgs@)yemr+ic)

where I denotes the identity. Since g € P pA (%) was arbitrary, with Lemma 4.3.2 we
deduce

Vve HPFU(@) 0 |v— Wl ey =¢ inf v+qllgrie) = CVgrng:
qePp (1) 0

The estimate of the approximation error is proven by a transformation to the
reference element.

First we will need some transformation formulas for Sobolev norms. Let 7 C R?
be a plane panel as before (triangle or parallelogram) with an affine parametrization
yafine -z — 7. Tangential vectors on t are defined by b; := dyfin/9%; for
i = 1,2. The (constant) normal vector n; is oriented in such a way that (by, b2, n;)
forms a right system. For ¢ > 0 we set I, = (—¢, ¢) and define a neighborhood
U, C R3 of 7 by

U={zeR’:3(x,0) et x I :z=x+an}. (4.199)
A function u € H**1 (1) can be extended as a constant on U:
uw* (x +ong) = u(x) V(x,a) €t x 1.
The surface gradient Vgu is defined by

Vsu = Vu* (4.200)

T 9
which gives us

|M|fv_11(.r) =[(VSM,VSM)~
T

The pullback of the function u to the reference element is denoted by & := uo y2ffine,
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Lemma 4.3.4. We have

7| ~12
w220 = = [ 1
FO ) J

2 7] Sr —1TA
|u|H1(r) = m A<Vu,Gr Vu>,
T

where V denotes the two-dimensional gradient in the coordinates of the reference
element.

Proof. The transformation formula for surface integrals yields the first equation

T N
[|u|2 - Q[W.
T |T| T

We define y : R3 — R3 forX € 7 and x3 € R by
X (X, X3) = )(ifﬁne (X) + X3n; = B;X + X3n; + b,
and we set U, := ¥~ ' (Us). With this we can define the function 7i* : U, > K by
nr=u*oy
and it satisfies &t*|; = # in the sense of traces. The chain rule then yields
(Vsu) o Xe;fﬁne — (Vu*) ° Xz;fﬁne — (Jr_l)T Vit (4.201)

with the Jacobian J; = [B;, n.] of the transformation y. From this we have

(VSIA) ° Xifﬁne — (J:l)T /V\I,/\l*

1

Elementary properties of the vector product give us
-1
1 (r—I\T G, 0
sy =5
and from this it follows that
” (Vsu) o yitine ||2 = <§ﬁ G:1§ﬁ> on7z.

Combined with the transformation formula for surface integrals we obtain the
assertion. O
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Lemma 4.3.5. We have

_ 2 (he\*
G| < 2h2, 1G] < — (—pf) h;2. (4.202)
T

Proof. The Jacobian B of the affine transformation yfi"® has the column vectors
b1, b,. The maximal eigenvalue of the symmetric, positive definite matrix G; can
be bounded by the row sum norm

IGell = max {Ibi[[* + (b1, ba) | < 202,
since b; are edge vectors of 7 (see Definition 4.1.2). For the inverse matrix we have
e | [ Ib2> _<b1,b2>] _ (ﬂ)z[ b2 > —<b1,bz>}
F 7 detGe [—(bi,by)  [by]? 1) L= (bi.b2) [ba]?

From this we have for the largest eigenvalue

AN 2 4
” 1“ < ( || ) Zh% < iz (}i) hr—z_
T[IO‘L' T IO‘L'

|
Lemma 4.3.4 can be generalized for derivatives of higher order.
Lemma 4.3.6. Let T € G be the affine image of the reference element ©
yAne (2)  with x4 (R) = B.X + b,
Then
ve Hf (1) <= v i=vo y¥i ¢ HX(2), (4.203)
which gives us forall 0 < £ <k
|V|H5(r) = Cl |V|Hf(r)» (4.2044a)
Blaee < C2hi™ Plgee (4.204b)

with constants C1, Cy that depend only on k and the constant kg, which describes
the shape-regularity (see Definition 4.1.12).

Proof. The equivalence (4.203) follows from the chain rule, as the transformation
is affine and therefore all derivatives of )(afﬁ“"’ are bounded. We will only prove the
first inequality, the second can be treated in the same way.

Since C* (z) N H* (7) is dense in H* (7) (see Proposition 2.3.10), it suffices to
prove the statement for smooth functions.
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Let v*, v, U, (78, v*, 1, J; be as in the proof of Lemma 4.3.4. In the following
o will always denote a three-dimensional multi-index o € Ng and d denotes the
derivative in the coordinates of the reference element. Then we have

Ve = Z/W* = Z/|3a* oxl.

loe|=¢ ||5

The chain rule then yields
((0v*) o x) = ((@:1)79%) o,

where V* denotes the three-dimensional gradient (while, in the following, the two-
dimensional gradient will be denoted by V, as before). For the (transposed) inverse
of the Jacobian of y we have (J7!)" = [A;, n,] with

T T
A, = [a;, 2] e R¥?, a, := Il (b2 xng), ap:= il (n; xby).

] 7|

Since d3v* = 0 we obtain

‘We use the convention
AYCAYCE wo_ i

> Z Z Z = (G2)GR) and o = TTaf.

M=o H1=0 =0 u3=0 i=1
for the multi-indices u, @ € NJ. With this we have

~\ O
(AV) o= 3" (2)atagdy 055,
w=<o

In order to estimate the absolute value, we use

he K2

G1-1
fans| < il < 725 < e
T

and obtain with |«| = £

‘(A@)a 9(&)‘2 <cnty” ‘é‘fé‘;‘“o o[ (4.205)
u<e
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with a constant C, which depends only on £ and the constant kg. By integrating
over T we obtain

*||2 |T| 2 2-20 A2
0" 220 = ’(AV) 0y = CH2 By
If we sum over all @ with || = £ we obtain the assertion. O

The following corollary is a consequence of (4.205).

Corollary 4.3.7. Let t € G be the affine image of the reference element ©
T = ey with  y¥MC(X) = B,X + b,.

Then
ve CK(r) = 1= vo yifie ¢ Ck(3),

which gives us forall 0 < £ <k

Vcew < Crlit Plee, (4.20632)
Plee) < Caht Pleeer (4.206b)

with constants C1, Cy that depend only on k and the constant kg, which describes
the shape-regularity (see Definition 4.1.12).

Theorem 4.3.8. Let © € G¥" pe the affine image of the reference element T =
yne (). Let the interpolation operator m: H* () — H'(?) be continuous for
O§t§s§k+1andlet

VgePl: Tig=gq (4.207)
hold. Then the operator T1 : H*(t) — H'(t), which is defined by:
Mv:= (ﬁﬁ) o (™)™ with b= v o yifine (4.208)
satisfies the error estimate
Vve H* ()t [v— TV ge(ry < ChE sy (4.209)
for 0 <t < s < k + 1. The constant C depends only on k and the shape-

regularity of the surface mesh, more specifically, it depends on the constant kg in
Definition 4.1.12.

Proof. According to Proposition 4.3.3, on the reference element T we have

~
~ A

—Iv
H'(?)

< CA|\A)|HX(.3).
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We transport this estimate from  to t = " (). With Lemma 4.3.6 we obtain
the error estimate for s = k + 1

V=TIV i (ry < CAE o= TID

< Chy™ Plgrsiey < CRE T Wl ey,

For s < k + 1, (4.209) follows from the continuity of o: HS () — H'(7) by
means of interpolation (see proof of Theorem 4.1.33). O

Remark 4.3.9. The interpolation operator Tk from (4.73) satisfies the prerequisites
of Proposition 4.3.3 with p < k > 1 by virtue of the Sobolev Embedding Theorem.
For k = 0, I1 can be defined as a mean value:

<ﬁv)(x)=%/%v Vx € 1.

4.3.2 Approximation on Curved Panels*

In this section we will prove the approximation properties for curved panels that

satisfy the following geometric assumptions (see Assumption 4.1.6 and Fig. 4.6).
Forx € 7 € G, n; (x) € S, denotes unit normal vector to  at the point x. The

orientation is chosen as explained in Sect. 2.2.3 with respect to the chart y.

Assumption 4.3.10. For every Tt € G with the associated reference mapping yr
T -1

e There exists a regular, affine mapping y2¢ : R3 — R3 of the form

affine (g _ al X b;
a-[1)(5)+ ()

witha € R??, (%, %3) € R? xR, b; € R? and deta > 0.

Fig. 4.6 Left: curved surface panel t and three-dimensional neighborhood U, . Middle: flat surface
panel 78" with neighborhood U, Right: reference element 7 C R?

* This section should be read as a complement to the core material of this book.
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o There exists a C*®°-diffeomorphism y : U — V that is independent of G, with
open sets U,V C R3 that satisfy

affine g, gaffine .= {yaffine (%0) : X € T} x (—¢,8),
. CV, e:={&x+aon;(X):Xer1,ac(—¢¢)}

for an ¢ > 0 such that
xe (%) = o xi™ (%,0).

e Forevery function u € H* (t) with a constant extension
u* (x + ang (x)) = u (x) (4.210)

we have
3 (u* o y o xe) /o%; = 0. (4.211)

T

A situation of this kind was introduced in Example 4.1.7 (also see [170, Chap. 2]).
First we will prove a transformation formula for composite functions.

Lemma 4.3.11. Let n : U — V be a C™®-diffeomorphism and let U,V C R3 be
open sets. For a functionu € H* (V) we set it = uo n. Then it € H* (U) and for
allx € NS, 1 < |a| <k, we have

et
@) on' =Y cpdfu (4.212)
1BI=1

with coefficients cg that are real linear combinations of products of the form

1]
[ tn,- (4.213)
r=1

The relevant indices for 1 < r < |B| satisfy the relations 1 <n, <3, 4, € NS and
18 _
dorey | = |l

Proof. For the equivalence u € H* (V) <= @ € HF (U) it suffices to prove
(4.212) for smooth functions. We will prove Formula (4.212) by induction. Let ej
be the k-th canonical unit vector in R3.

Initial case: For |a| = 1 we obtain explicitly

@) on ! = Z cﬁaﬂu, where for B = e; we have cg = 0% .
|Bl=1

Hypothesis: Let the statement hold for |o| < i — 1.
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Conclusion: Let || =i, choose k = 1,2,or3,andlet&d = o — e € N03. Thus
we obtain

(0%) o 77_1 = 0k (3&17!) o 77_1 = | o Iilj cg (8ﬁu> on|jo 7]_1

1B1=1
i—1 i-1 3

= Z (8kCﬂ) 8ﬂu+ Z Z(C‘ﬁakﬂj) (8j3/3u>.
1Bl=1 [Bl=1j=1

This proves the assertion if we show that dxcg and cg (ak n j) are of the form
(4.213). With the Leibniz product rule we obtain

18] 181 18]

Ok [ [0 1, = D @07y, [ ] 97 1,
r=1 j=1 r=1
r#j

and the expression on the right-hand side is a linear combination of terms of the

form
1B

Haﬂr Nn,
r=1

with erﬂzll |iir| = i. The assertion follows analogously for the product cg (Bk n j).
O

Corollary 4.3.12. 1. Let the conditions of Lemma 4.3.11 be satisfied. Then

Cil il 2wy < lullz2gry < Cz il 2wy
and
k k
~12 2 2 ~12
liltpewy < Cr ) _lulgiqry  and  Julfgeqyy < C2 ) ldlgi gy -
i=1 i=1

The constants Cy, Co depend only on k and the derivatives of n, = up to the
order max {1, k}.

2. Let Assumption 4.3.10 and the conditions of Lemma 4.3.11 be satisfied with n <
x. Fort € G, v .= y=V(t) and u € H* (1), it (X) := uo x (X, 0) we have

—1 ~n2 2 ~n2
Cs ||u||L2(rafﬁne) = ||u||L2(‘[) =C4 ||u||L2(rafﬁne)
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and

k k

~12 2 2 ~12

|”|Hk (aine)) <G Z |”|Hi(r) and |”|Hk (@) <Cq4 Z |M|Hi(.[afﬁnc) .
i=1 i=1

The constants Cs, C4 again depend only on k and the derivatives of y, x ' up to
the order k.

Proof. Statement 1 follows from the transformation formula (4.212).

For the second statement we define a constant extension of « in the direction of
the normal as a function u*, according to (4.210), and note that the normal derivative
of u* vanishes, i.e., we have |u*| gk (g,) = |u| g (r)-

From (4.211) we have |u™ o x| g« (afine) = |it] & (gaine) and, thus, we have the
assertion in Part 1. O

At the next step we will apply Lemma 4.3.11 to the composite reference mapping
and study how far this depends on the panel diameter /.

Lemma 4.3.13. Let Assumption 4.3.10 and the conditions of Lemma 4.3.11 hold
withn < y. Fort € Gandu € H* (v), t C V, it := u o y; we have

ve H¥(t) <= b:=vo y: € H*(?) (4.214)
and
k
Julfk ey < CLhT ) il ) (4.2152)
i=1
k
k) < CahZ72 ) Nl ey - (4.215b)

i=1

The constants C1, Cy depend only on k, the constant kg of the shape-regularity (see
Definition 4.1.12) and the derivatives y, x ™' up to the order k.

Proof. It follows from Corollary 4.3.12 that

k
2 ~12
|u|Hk(‘[) = CZ|M|Hi(rafﬁnc)'

i=1

We can therefore apply the transformation formulas from Lemma 4.3.6, which gives
us the estimates
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k k
2 2 —2i |~2 2—2k ~12
ey = Crhy D2 [l ey < C2hT26 Y [z
i=1 i=1
k
~12 2k—2 |~|2 2k—2 2
|”|Hk(%) < C3hz" ™7 |ul (zafine) < Cyh; Z |”|Hi(,) .

i=1

With this we obtain the analogy of Theorem 4.3.8 for curved panels.

Theorem 4.3.14. Let Assumption 4.3.10 and the conditions from Lemma 4.3.11
hold with n < x. Let T € G be the image of the reference element T as given
by T = y o yin (2). Let the interpolation operator 11 : H%(2) — H'(%) satisfy
the conditions from Theorem 4.3.8for 0 <t <s <k + 1.

Then we have for the operator I1 : H(t) — H'(t), which is defined by

Iy := (ﬁf/) ox;' with v:i=voy,
the error estimate for0 <t <s <k + 1
Vve HF M @) 0 v — Tl ey < CRET V]l oo - (4.216)

The constant C depends only on k, the shape-regularity of the surface mesh via the
constant kg in Definition 4.1.12 and the derivatives of y, y~' up to the order k.

Theorem 4.3.8 and Theorem 4.3.14 contain the central, local approximation
properties that are combined in Sects.4.3.4 and 4.3.5 to form error estimates for
boundary elements. The easiest way of constructing a global approximation for
continuous boundary elements and sufficiently smooth functions is by means of
interpolation. For this the functions u € Hp, (I') need to be continuous. In the
following section we will show that this is the case for s > 1.

4.3.3 Continuity of Functions in H} (I') for s > 1

In order to avoid technical difficulties, we will generally assume in this section that
we are dealing with the geometric situation from Example 4.1.7(1).

Assumption 4.3.15. I" is a piecewise smooth Lipschitz surface that can be para-
metrized bi-Lipschitz continuously over a polyhedral surface I': yr : ' — T.

Then the Sobolev spaces H¥(T") on I' are defined invariantly for |s| < 1, which
means that they do not depend on the chosen parametrization of I" (see Proposi-
tion 2.4.2). For a higher differentiation index s > 1, HpsW (") is defined as in (4.86).
These spaces form a scale with
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L*(") = Hy,(T) D H3,(T) D H] (), 0 <s <t (4.217)

Lemma 4.3.16. Fors > 1 every u € H (I') is continuous on T, i.e., H}, (') C
co(I).
Proof. T is the bi-Lipschitz continuous image of a polyhedral surface: I' = yr (f‘ )

and therefore it suffices to prove the statement for polyhedral surfaces. Let [/,1<
Jj < J, be the plane, relatively closed polygonal faces of the polyhedron.

Letu € H;W (f‘ ) for s > 1. The Sobolev Embedding Theorem implies that
ueCo (f‘/ ) forall 1 < j < J and, thus, it suffices to prove the continuity across

the common edges of the surface pieces r ;. For this we consider two pieces I and
r ; with a common edge E. Then there exists an (open) polygonal domain U C R?
and a bi-Lipschitz continuous mapping y : U — I; UT 7 with the properties

U,:=y! (f‘,) Uy =y ! (f‘j) and x|y, isaffine fork =1,2.
Uy, U, are disjoint and U = U, U Us.
e:=y ! (E) =U, NU,.
We only need to show that w := u o y is continuous over e. Clearly, we have
wr = wo yx € HS(Uy),k = 1,2, and w € H! (U). If we combine this result

with the statements from Theorem 2.6.8 and Remark 2.6.10 we obtain the assertion.
O

4.3.4 Approximation Properties of Sé’ !

We will now prove the error estimate (4.59) for the following two geometric
situations.

Assumption 4.3.17 (Polyhedral Surface). I" is the surface of a polyhedron. The
mesh G on T consists of plane panels with straight edges with mesh width h > 0.

Assumption 4.3.18 (Curved Surface). Assumption 4.3.10 holds and the condi-
tions from Lemma 4.3.11 are satisfied with n < y.

Theorem 4.3.19. Let either Assumption 4.3.17 or Assumption 4.3.18 hold. Let
s > 0. Then there exists an operator 15’_1 : H;W (') — Sg’_l such that

<C hmin(p+1,s)
L2() —

For a polyhedral surface the constant C depends only on p and the shape-regularity
of the mesh G via the constant kg from Definition 4.1.12. In the case of a curved
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surface it also depends on the derivatives of the global transformations y, y~' up
to the order k.

Proof. Let ﬁf : H¥ (1) — P be the L2-projection:
4 _ A
(Hfu,q)Lz(%) =(a)p  VaER) 4.219)
We lift this projection to the panels t € G by means of
(MPuy) (x) := (ﬁg’a,) ox7'(x)  Vxer,

where u; := u|, and @iy := u; o x. The operator Igp’_1 then consists of the
panelwise composition of T1Z:

Igp’_lu

= M%u YVt eg.

T

Obviously, this defines a mapping from Hj, (T') to S 5 ! The operator ﬁf satisfies
the prerequisites of Theorem 4.3.8, because we have for the orthogonal projection:

1. ano”o <y VPeL’(®).

Since ﬁf ¥ is a polynomial in a finite-dimensional space P2, all norms are equiv-
alent and there exists a constant C, > O such thatforall0 <t <s < p 4+ 1 we
have

s

=G, |03 = Collblg < Colil, VP HU (D).

s
2. It follows immediately from the characterization (4.219) that
ﬁq =gq Vq € IP’I,A.
Therefore we can apply (4.209) or (4.216) with + = 0 and obtain the error

estimate
‘v - Igp’_1 v

forallv e HS(I') with 0 < s < p + 1. If we then square and sum over all T € G
we obtain the assertion. O

Theorem 4.3.19 gives us error estimates in negative norms by means of the
same duality argument as in the proof of Theorem 4.1.33. This is the subject of
the following theorem.

Theorem 4.3.20. Let the assumption from Theorem 4.3.19 be satisfied. Then we
have for the interpolation I_é”_l and0 <t <s < p+ landallu € Hy, (') the
estimate

lu — 127 ull - ry < CH ull s .- (4.221)
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Proof. The continuous extension of the L2 inner-product to HP_Wt (I') x Hlfw (') is

again denoted by (-, -),. Since / gp ! consists locally of L2-orthogonal projections,
we have for an arbitrary ¢g € SZ =1

i),
‘(u ¢ "),

o187

= sup
H™'(T)  ,eH!(T)\{0} el &
Y
= sup 0l (4.222)
peH! (T)\{0} loll e ry

(see proof of Theorem 4.1.33). If we choose pg = Ié”_lgo € Sé”_l, (4.221) follows
by means of a twofold application of (4.218). O

Remark 4.3.21. Corollary 4.1.34 follows from (4.221) with t = %

4.3.5 Approximation Properties of Sgp 0

Here we will prove approximation properties of continuous boundary elements that
have already been introduced in Proposition 4.1.50.

Theorem 4.3.22. Let Assumption 4.3.17 or Assumption 4.3.18 hold:

. . . p.0 . p,0
(a) Then there exists an interpolation operator 15" : Hlfw(l") — 8¢ such that

Hu _ Igp"’un < Ch* ™ Null g ) (4.223)

H!(T)
fort =0,1,1 <s < p+1landallu € Hy, (T). For a polyhedral surface
the constant C depends only on p and on the shape-regularity of the mesh G

via the constant kg from Definition 4.1.12. In the case of a curved surface it

also depends on the derivatives of the global transformations y, x~' up to the
order k.

(b) Letu € H® (T') for some 1 < s < p + 1. Then, forany 0 <t < 1, we have

[17,0

= 12%] < sy

H'(I)

Proof. Part a: Lemma 4.3.16 implies that u € Hy (T') C CO(T) for s > 1. We
define Igp’ou ont € G by

(15’%,) (x) == (71’12,) oxTl(x)  Vxer (4.224)
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with u; := u|,, #i; := u; o y, and the interpolation operator 17 from (4.73) for

the set of nodal points X, from Theorem 4.1.39. By Theorem 4.1.39 this operator
is well defined and satisfies

(Tpar) (2) = ite (z) V2 € 3.
qu =gq VYq € IP’;.

By Lemma 4.3.1 we have on the reference element

iy Z ‘(TP;”) (z)’)

exr

Hlpﬁ,

1] 2o
HIGE) — H Yl gty = 2 e

= ) li(z)|

zeX?

= 2 llillcozy = Cea llull sz -

Therefore Theorem 4.3.8 or Theorem 4.3.14 is applicable and for I < s < p 41
and ¢ € {0, 1} we obtain the estimate

.0

Yue H(t): |ug— 15 ur

—t

If we square (4.225) and sum over all z € G*"® we obtain (4.223).
Part b: By using Lemma 4.1.49 we derive from Part a the estimate

— 1% = OB ulgs 4.226
18], el sy (4.226)

fort € {0, 1}. We apply Proposition 2.1.62 with T = [ —Ié”o, Yo=Y, = H’(]),
Xo = L>(I'), X; = H'(I'),and # = ¢ € (0,1) to interpolate the inequality
(4.226). The result is

1_
IT 1| e yrrs @y < IT 220y ms oy 1T 1t oy ms @)
< (cng) T (chg ) = chg !

and this implies the assertion of Part b. O

Next we investigate the approximation property for functions in Hp, (I") for
0 = s = 1. Recall that Hj, (') = H*(T') in this case. In general, functions in
H? (T') are not continuous and the application of the pointwise interpolation / gp 0 s
not defined. We will introduce the Clément interpolation operator Qg : L' (T') —
Sé’o for the approximation of functions in H* (I") if 0 < s < 1 (cf. [69]). To avoid
technicalities, we consider only the case that all panels are (possibly curved) sur-
face triangles. Let Z denote the set of panel vertices with corresponding continuous,
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piecewise linear nodal basis (b;),c7. For z € 7 and t € G, we introduce local
meshes G, and G, by

Goi={te€G|tCsuppb,}, G:={teG|INT#0}.

The corresponding surface patches on I" are denoted by

W, = U?, W = Uf.

T€q, teGe

For functions f € L! (T") and z € Z, the functional 7, : L' (') — C is defined by

7, (f) = Sy dSY'

lwz| Jo,

Remark 4.3.23. For z € I, we set h, := maxceg, hc. There exists a constant Cy
which depends only on the shape-regularity constant kg such that

hy < Cohy Vted,.

Definition 4.3.24 (Clément interpolation). The Clément interpolation operator
Qg:L'(T) — Sé’o is given by

Qg f =) 7 (f) bs

z€T

The proof of the stability and the approximation property of the Clément inter-
polation employs local pullbacks to two-dimensional polygonal parameter domains
and then follows the classical convergence proof in the two-dimensional parameter
plane. The next assumption is illustrated in Fig. 4.7.

Assumption 4.3.25. (a) For any z € I, there is a two-dimensional convex and
polygonal parameter domain @, C R? along with a bi-Lipschitz continuous
mapping ¥, . @, — w, which satisfies: For any T € G, the pullback T :=

Y

Fig. 4.7 Pullback of a surface patch to a two-dimensional parameter domain
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1, ! (7) is a plane panel with straight edges. The pullback T can be transformed

to the reference element T by a regular, affine mapping which is denoted by
ffine
U/

(b) The reference mapping (see Definition 4.1.2) is denoted by X+ : T — 1, where
the reference element is always the unit triangle T = S, because we only
consider triangular panels. For curved panels, Assumption 4.3.18 holds so that

ffi
Xe=xoxz
where )(ifﬁ"e is affine and y : U — V is independent of G.
(c) For any © € G, the image y" (%) is the plane triangle with straight edges
which has the same vertices as t, i.e., xM" is the componentwise affine

interpolation of .

Notation 4.3.26. If t, 7, T, ¢, x2", etc., appear in the same context their
relationships are always as in Assumption 4.3.25.

Let g, € L® (&,) denote the surface element

g, (x) 1= \/det(J] ()], (x)) Vxed, ae.,

where J, denotes the Jacobian of y,. Let the constants 6, ® be defined by

-1 _. ploil N
- HLoo(;,) —~9|wz| and &2l Loo (s, =: 6@. (4.227)

Lemma 4.3.27. Let Assumption 4.3.17 or Assumption 4.3.18 hold:

(a) Then, 0, respectively ©, in (4.227) can be bounded from below, respectively
from above, by constants which depend only on the shape-regularity of the mesh,
the ratios

0} o,
€1 := max max | and Cjp := maxmax | ~z| , (4.228)
2€7 T€G, |'1:| 2€7 tE€C, |7:|

and, for curved panels, on the global mapping y (cf. Assumption 4.3.10).
(b) There exists a constant C, so that, fori € {1,2} and any X € T C @,, we have

diam T
207

19 {(x — x2e) 0 e R)}] < Ca K2, (4.229)

Proof. Proof of part a. Let T € G, and 7 := y, ! (v). The restriction y,r := xu|;

can be written as
affine

Xzt = Xz ©1] )

where y; : T — t is the reference mapping as in Definition 4.1.2 and 7 is the unit
triangle as in (4.13). Further, n*" : # — % is some affine map. For x € T, let
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A ~ ne\ —1 /A
%= 7' (x) and X := (™) (X). Then

Jz,r (i) = Jr ()A() Jafﬁne (i) s (4230)

affine

where J; ¢, Jz, Jatine are the Jacobi matrices of yz ¢, xz, , and

g (X) = \/det Jafﬁne (X) G (X) Jatfine (i)) with G (X) := JI ) J: X).

We introduce Ggffine 1= J;rfﬁne.]afﬁne and employ the multiplication theorem for
determinants to obtain

8z (i) = |detJafﬁne| V detG‘r (ﬁ = M (4231)

2|7

If 7 is a plane triangle with straight edges then

VdetG, %) = 21].

For curved panels, we have y; = y o x2f" (cf. Assumption 4.3.10) and obtain by
arguing as in (4.231)

CX2 |_L,afﬁne| < det Gr ()}) < CXZ |_L,afﬁne| with _L,afﬁne = afﬁne ( )
where the constants 0 < ¢, < C, depend only on y, i.e., are independent of the

discretization parameters. From this we derive, by using the bi-Lipschitz continuity
of x and the shape-regularity of the surface mesh, the estimate

2ccy 7] < ZCth < VdetG; (X) < 2CXh3 <2CCy 7|,
where ¢, C depend only on the shape-regularity constant kg. Thus

CCy |, T T w
cex |l <ch% lgz (®)| <CCX:T: _CCXC1|wTZ|.

c1 |wg] ~

Proof of part b. The statement is trivial for plane triangles with straight edges
because the left-hand side in (4.229) is zero.

Let z € 7 and assume that T € G, is a curved panel. For any X € T C @, we
have

H al_ {( Xifﬁne) affine (X) || Z H 9 aftme) (X) H |a n

(4.232)
where X = n*i" (%) € £.
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Let T; X< denote the p-th order Taylor expansion of y, about the barycenter M

affine

of 7 and let 4" = fl X+ be the affine interpolation at the vertices of 7. Then

Xt Xiﬂme = (Xr - ﬁ){r)"‘(ﬁ){r - Xifﬁne) = (Xr - ﬁ){r)"‘fl (ﬁ){r - Xr) .
For k = 0, 1, this splitting leads to the estimate

e =2 lesce = (14 ] ooy cnge)

Standard error estimates for two-dimensional Taylor expansions result in

r_’fl)(r

Cck(®)

1 o
J o2~
co(%) = 2 Orgjaxz Halaz Xz

Xr_ﬂ)(r

C()G) ’

Because Bjﬁ)(, =T (9 xz) we obtain

Haj)(r _ajﬂ)(r

= Haj)(r — Tod, x < max 319,79, xc ||COG)-

CO(%) Co(%) T o<i<1
Thus
aﬂme 7 Ja2—J
e = ey = (1 [ Loy ) s o452 2 gy

(4.233)
Next, we will estimate the first factor in (4.233). Forany w € C 0 (?), we have

A

|7

= max w(X w -
CO@ iisaver‘texoff| ( )| - ” ”COG)

We denote the vertices of T by ﬁl\: (0,0), ﬁz = (1,0), ﬁ3 = (1,1) and the
values of a continuous function w at P ; by w;, 1 < j < 3.1Itis easy to see that

~ Wy — Wi w(X) —w(y)
Jonfiw] gy = 2 =l = 270 < POZR Oy
co(®) HPZ_PIH wyer IX=¥Il

and, similarly, we obtain the stability of the derivative d,. Hence we have proved
that the first factor in (4.233) is bounded from above by 2.
To estimate the second derivative of x. in (4.233) we write the mapping 3" in
the form )
XM (%) = B:X + b,

with the (constant) Jacobi matrix B; € R3*2 and b; € R3. The columns of B, are
denoted by a;,a, € R3. As in the proof of Lemma 4.3.6, we use
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P (Xoxafﬁne _ Z Z '3' 'a az (aﬂ-i-v ) Xifﬁne.

;SENO veNO
[Bl=p1 [v|=p2

Next, we employ |(Bz)i,j| < h. and obtain for any ;1 € N2 with |u| = 2
sup |8 (x o x4™) )| < C3h?,
XET

where C3 depends only on the derivatives of y which, by Assumption 4.3.10, are
independent of G. Thus we have proved that

lxe = %™ crzy = 2Cs02 (4.234)

and it remains to estimate the last factor in (4.232). Because 7" is affine, it is
straightforward to show that Ja_fflme € R?*2 [cf. (4.230)] has column vectors B — A

and C — B, where A, B, C denote the vertices of T. Hence

P |:(C—B)2 —(C—B)l}
atiine — ~ .
27| L-(B—-A), (B—-A),
Consequently
diam T
9; piitine ) 4.235
|9;m3"e| < 7 (4.235)
O

As a measure for the distortion of the local patches w, by the pullback, we
introduce the constant Cy by

Cy 1= max {|a’3;|_1/2diama3;}. (4.236)
yASS

Theorem 4.3.28. Let Assumption 4.3.25 be satisfied.

There exist two constants cy, ¢ depending only on the shape-regularity constant
kg [cf (4.17)], the constants Cq and C, [as in (4.228)], and, for curved panels, on
the global chart x so that

Iv="0gvl12¢) < c1the Va1, and  [1QgVIm1) = 1 IVl a1 (0
(4.237a)

forallv e H' (') and all triangles T € G. Also,

Iv—0¢vllgom) < c2hG ® Wlgsqy and Q¢ gsryemsa) < C2
(4.237b)
forany0 <o <s <landve H* ().
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Proof. We present the proof in eight steps (a)—(h).

(a) Forz € Z, let y, : &, — w, be the mapping as in Assumption 4.3.25. For
¢ € H'(w,), the pullback to @, is denoted by ¢ := ¢ o x,. The Lipschitz
continuity of y, implies that § € H' (&y).

We consider 7, () € C as a constant function and obtain

o= @y = [ @156 —m ) d% (4.238)

Case 1: First, we consider the case of flat panels with straight edges. Note that, for
any 1 € Gyand 7 := x;' (t), we have g,|; = |t] / |T|.
Lett € G,. Thenforanyx € T = x; ! (1)

§ )= = ) z|[ 0=

f~g¢
Wy

.- |
=5 (® - |Z/gz <p()—| |Z ~ (4.239)
teg, @s teg, | |
|t | . .
=y o) — 7;9)
teg,
with ;¢ 1= il Ji f . Applying the L2?-norm to both sides yields
16 - mupll < 3 - o] 16 - w6l - (4.240)
Z

teg,

Because 7' C @, are both convex we may apply Corollary 2.5.12 to obtain

|0z] \ diam @, | .
19 =7iflliem =10 = midllz@y = \1 4\ |~ W@
diamw,  _
< (1 + \/C1> - 1151, (4.241)
where Cj is as in (4.228). Inserting this into (4.240) yields
_ diam @,  _
¢ — el 2z) = (1 + v C1> - 1Pl a1 (a,) -

We sum over all T C @, and apply a Cauchy—Schwarz inequality to derive the
estimate

. diam @,  _
16 = 79l 1205,) < VeardG, (14 V/Cr) == |l 3,



4.3 Proof of the Approximation Property 269

where the number of panels (card G;) is bounded by a constant which depends only
on the shape-regularity of the surface mesh.
The combination with (4.238) leads to

lp = 72 (D 2,y = V182l oo 10 = 72l 126,

(4.227) diam &,
< G| —— 19l g1,
||

< C4Cahz 10| g1(a,)
with C4 := /@ cardG, (1 + +/C1) /7. From Lemma 4.3.6 resp. Lemma 4.3.13 we
obtain
|¢|§{1(651) = Z |(/~)|§{1(;) = CS Z |(/)|§{l(r) (4-242)
FCw, T€G,
and, finally, for any t C w,
lo—72 @) 2w < Coha ¢l 11w,y < CoCshe |9l Him, With Cs = CaCay/Cs.

(4.243)
Case 2: Next, we consider the general case of curved panels. As in (4.239) we derive

e |7
o Ziwzi( G “")

teg,

=2

teg,

1
||t| g(‘;’ —77¢) + m [dt(ﬁ} (4.244)
7

with dy ;= 1 — ||7;|| gz|7- The first difference in (4.244) can be estimated as in the

case of flat panels while, for the second one, we will derive an estimate of d;. We
use the notation as in Assumption 4.3.25 and employ the splitting

| putine | 1 affine T
d=|1- i +m (26| = 2|T| (galp) . (4.245)

where ¢affine = yaffine (7 j5 the plane triangle with straight edges which interpolates
T at its vertices.

We start by estimating the second term in (4.245). We employ the representation
(4.231) for Gram’s determinant to obtain

2|T|(gl7) = &

where g; is Gram’s determinant of the reference map y; : T — f, i.e.
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gt = [101)e x D2 x¢ -

The area 2 |tafﬁ“°| can be expressed by

2 |tafﬁne| — ”al)(afﬁne afﬁne ” _ gafﬁne (4.246)
p .
Hence
|2[607] =2 [T (galp)| = |88 = 0] = [ 0248™ x B225™ | = 18120 x D20
4.247)

Ha Xaﬂme N Xafﬁne _ (al)(t % aZXt) ||

= 91 (e = ™) x 214
+ ||a Xafﬁne % 82 ( thifhne) || .

We employ (4.234) to obtain

2|2 [T el < 20082 (1ol )+ 025 e )

The estimate |9y 3™ || () < hi is obvious because tfine interpolates ¢ in its

vertices. For the other term, we use

3
192 ¢ llg.00 2y = 2: (372 0 x3"™) 02 (™), <Chy.

Leo(2)
where C depends only on the global chart y but not on the discretization parameters.

In summary we have proved that

|| = |T] (alt)| _ C5Che

|£] ¢

where ¢ depends only on the shape-regularity of the mesh and the global chart y.
The first term of the sum in (4.245) can be estimated by using (4.247)

t afﬁne
) < [l

_ GsCh} _ C5Chy.
B 4 ¢

| tafﬁne |

|I| | afhne
- |

l£]

This finishes the estimate of d;
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C;C
|d;| < 2=Zh,

Inserting this into (4.244) and proceeding as in the case of flat panels yields

) 1] /1 c3c B
16 = mapllag) < 3 i 19 = midliae + 3 f 2= ey 191y
teg, Wy teg, @z

(4.241) diam @, C3C./Cy -
= (14 V0) = il ey + 2 82y

We sum over all T C @, and apply a Cauchy-Schwarz inequality to derive the
estimate

. diam @,  _
16— o2y < VeardG,d (14 VCr) =16,
C3C«/

SNy, ||§0||L2(w)}

From Lemma 4.3.6 resp. Lemma 4.3.13 we obtain the scaling relations
8 | a| 2

|‘P|H1(wz) =GCs |¢|H1(wz) and ¢ | | ||€0||L2(wz) = ||€0||L2(wz) =Cs | i| ||‘P||iz(wz)
and, finally, for any 1 C w,
lg = 720l 12(,) = Cola |9l H1 (0, = CoCehe 1011 w,) - (4.248)

where 66 depends on Cy, Cy, Cs, Cs, 55, and card G,. Let Cg := max {56, 66}
[cf. (4.243)].

(b) Let T € G. The set of vertices of t is denoted by Z;. Then

bezl on .

x€Z,

By using Step a, we derive

lp — Qg@ll2y = || D bu (@ — 74 (9)) <Y b9 — (@)l 2r)

2€I7 L2(1) 2€1¢

< e —m@l2m < D e =7 @12,

2€7¢ 2€T¢
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< CoCehy Z el 1w,

2€71¢

< V3CoCshz | 1¢131(wy (4.249)
2€71

<V3CoCehz [Y . D el

t€wr 2z€Z1:tCw,

< Crhelollat o) (4.250)

with C7 := 3CyCe.

(c) By summing over all panels we obtain

lo = Qgoll7amy = Y llo = Qo0ll72i) < C7hE D 9151 (0

T€G T€G
2 2
= C%héz Z ”(p”Hl(t) = nghé ”(p”Hl(l")’
teg teG:itCwr
where Cg = C7Cnl/2 and
Cy:=maxcard{r € G:t C w}
1eG
depends only on the shape-regularity constant.

(d) For the L? (T")-stability we repeat the first steps of (4.249) to obtain

10601120y < Y 172 (@)l 120y -

2€71
The Cauchy-Schwarz inequality yields
72 @) < a2 9l 20,
and as in (4.250) we derive
106¢lr2) < Y 1912260y < V319l 22¢0r) - (4.251)

2€71¢

A summation as in Step c results in the L2 (I")-stability of the Clément interpolation
operator

10692y < V3Cillel L2 - (4.252)
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(e) From Step c and Step d we conclude that

le — Qgell2qry < Collell2qry and  |lo — Ogoll2ry < Cshg @l g (r)

hold with Cy := 1 + ,/3Cy. Hence the approximation result for the intermedi-
ate Sobolev spaces H® ("), s € ]0, 1], follows by interpolation as in the proof of
Theorem 4.1.33.

(f) For the local H !-stability we proceed as in Step d, respectively as in (4.249).
Recall the definition of the surface gradient as in (4.200) and (4.201) to derive

1069l m1(y = | Y_ 7 (¢) Vsh, = | Y (m(9) — 74 (9)) Vb,

2€T1 L2(7) z€Tr L2(7)

(4.253)

for any fixed zg € Z;. Let ¢, := Iw_lrl fwr @. Then 7, (¢r) = 74, (¢r) = ¢ and
|7Tz (¢) — 74 (§0)| < w2 (¢) — 7 (@0)| + |7Tzo (@) — 72 ((P)|

1 1
‘ L / @ —0)
|w10| )

|a)z| w,
_Me—dlizwy | 19~z
|1/2 1/2

(o —@o)| +

|wz |a)z(, |

In a similar fashion to (4.243) and (4.248) one derives for D € {w,, wy,}

lg = @ell2py = 19 = ¢rell 2@,y = C7 (diam o) (@]l g1 ;) -

Hence
|72 () = 2 (@)] = Cro |l 111 @) - (4.254)
where C1o depends only on the shape-regularity constant and the global parametriza-
tion y.
In Theorem 4.4.2 (with £ = 1 and m = 0), we will prove the inverse inequality
and, thus, obtain the estimate

IVshall 2y < Chyt ball 2y < ChT |2V < Cuy, (4.255)
where C;; depends only on the shape-regularity of the mesh and the global

parametrization y.
By inserting (4.254) and (4.255) into (4.253) we derive

Q60| pi(y < 3C10C1 ¢l g1 (w,) -



274 4 Boundary Element Methods

The combination with (4.251) leads to the local stability with respect to the |||| g1(,)-
norm and a summation over all panels as in Step c results in the global H !-stability

196¢ll a1y = Crzllellmry -

(2) Applying Proposition 2.1.62 with Xg = Yo = L2 (I') and X; = Y1 = H' (")
we obtain by interpolation of (4.252)

||Qg||H~V(I‘)<—H~V(F) = ”Qg”};ir)(_LZ(r) ”QQHHI(F)(_HI(F) <Ci3

with Cy3 := (3Cﬂ) Ea i,
(h) Parte and g imply that

lo — QgellL2qry < Cshgllellgsay and lo— Qcollgsary < (1 + C13)ll@ll gs(ry -

We apply Proposition 2.1.62with T = I — Qg, Yy = Y; = H* (I'), Xo = L? (I),
X1 = H(I'), and & = o/s € [0, 1] to interpolate these two inequalities. The
result is

9
1T o ry«ms )y < ”T”L2(F)<—H‘(I‘) ||T||Hs(r)<—Hs(r) (Csh ) "+ Cp)’
= Ci4hg°

with Cy4 := Csl_a/s (1 + C13)°/* and this implies the first estimate in (4.237b). O

In Sect.9 we will need an estimate of the surface metric on w, compared with
the two-dimensional Euclidean metric on @,. Since w, may consist of several panels,
the local Assumptions 4.3.17 and 4.3.18 have to be supplemented by the following,
more global Assumption 4.3.29 which states that I" has to satisfy a cone-type con-
dition and that the minimal angle of the surface mesh has to be bounded below by a
positive constant (see Fig. 4.8).

Assumption 4.3.29. . Forallt € G, x € '\t andy € 1, there exist ¢ > 0 and an
Xo € T such that

Ix—xoll = dist(x.7) and [x—yI” = ¢ (Ix = xol* + %0 — ¥II°).

. SR

Fig. 4.8 TIllustration of the cone and the angle condition for the surface mesh
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2. For all t,t € G whose intersection consists of at most one point, there exists a
point p of t such that

Ix=ylzc(x-pl+Ip-yl)  Vxez,Vyer

3. Forallt,t € G with exactly one common edgeTNt = E and forallx € T,y € ¢
there exists a pointp € E such that

ly =xl = ¢ (ly —pll + llp—x[D-

Lemma 4.3.30. Let Assumption 4.3.29 be satisfied and let Assumption 4.3.17 or
Assumption 4.3.18 hold. Then

diam @,

o e ® - @I = CIX-§I VX§¥ <o,

clx=yl =

where C depends only on the global chart y but is independent of the surface mesh.

Proof. (a) Let t € G, be a surface triangle with vertices A, B, C. First, we will prove
the statement for X,y € 7 = x, ! (7).

Let ¢ffine ;= yaffine (7) pe the plane triangle with straight edges which interpo-
lates T in its vertices. Note that y (t*"¢) = 7. Hence

affine

XX —xy=JyWEx—-y) Vxyer

where J, € R3*3 is the Jacobi matrix of the global chart y and w is some point in
Xy. Note that the largest and the smallest eigenvalues A, and A, of the positive
definite Gram matrix G, depend only on the global chart y and are, in particular,
independent of the discretization parameters. Thus

Vi K= Y1 = 1200 = 1 D = Ve Ix =y Vx.y € 7o,

Let G¥fine ¢ R2*2 denote the (constant) Gram matrix of x2". From Lemma 4.3.5
we conclude that

N ~ A A A a1/2 A oA
[xe™ &) — ™ @) = (6™ G=9). G=9) " = V2he [R -7

for all X,§ € 7. Because the matrix Gifﬁ"e is symmetric and positive definite, its
minimal eigenvalue A2 can be expressed by

Jaffine _ H (Gifﬁne)_l H_l

min
We employ Lemma 4.3.5 to obtain

[ &) = 2™ @) = che 5= 31
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for all X,§ € 7, where C depends only on the shape-regularity of the mesh. Thus
we have proved that

Cy Aminfiz ”)A( _§7” =< “Xt ()A() - X(y)” = 2Amaxiz ”i_&”

for all X, § € 7. Finally, we replace X and § by n*" (X) and 7" (§). From (4.235)

we derive the estimate for the largest eigenvalue A7 of the Gram matrix G; of
affine

n
4. 235) diam T -
Amax V2 2] < C diam™! 7,
T

where C depends only on the shape-regularity constant and the global chart .
For the smallest eigenvalue we use

[ 1 @]

€.&) &)
where X, ﬁ, C denote the vertices of 7 and € = B- K, e, = C — B. Thus
IG,"| <2diam?%

and the minimal eigenvalue )U,;‘i" satisfies

/9 min _1/2 1
A ”G 1” \/_dlamr

The combination of these estimates leads to

c

- h .. Y.
X5 <l ® — Ol = C5 —|x—§| VXyeti
l1amT
(4.256)

dlam

(b) We assume that G, contains more than one panel and consider the case that x
and y belong to different panels t,¢ € G,. Note that

e _hs <C.hz~ VT € g,

diam @, ~ diam7 diam @,

where ¢ and C depend only on the global chart y and the shape-regularity
constant. Assumption 4.3.29 implies that one of the following two cases is
satisfied:

(i) The panels t and ¢ share exactly one common edge T N7 = E. Then there
exists a point p € E such that

ly =xl[ = ¢ (ly —pll + llp—x[D-
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The combination of (4.256) and a triangle inequality leads to

ly—x||=¢

(Iy=pll +1lp—x)=¢ Iy —xI

z z
diam @, diam @,

with p := x; ! (p). For the upper estimate we use Xy C w, since @, is
convex. Let (ﬁ,-)?zo be the minimal number of points lying on Xy such that

Po=X, p;=y, and V1 <i <gq:Pp,—1p; is contained in some T C @;.

Letp; = yz (pi), 1 <i < g. Then the upper estimate follows from

q
||y—x||52||pl-—p,-_1||sc. Nanl pi-ill = C ~||y—x||

i=1
(ii) 7 and 7 share exactly one common point {z} = T N 7. Then
X =yl = ¢ (lx—z] + [z=ylD

and the rest of the proof is just a repetition of the arguments as in Case i. ]

Lemma 4.3.31. Let Assumption 4.3.17 or Assumption 4.3.18 be satisfied. For t €
Gu, let Yz,0 := Jalz, where T := y; ' (v). Then, for any p € N¢ with k := ||,

he \*
10" xae oo @) = € (diam@) ’

where C depends only on k, Cq as in (4.228), Cq as in (4.236), and the global
chart y.

Proof. Recall that y, ; = y o k™, where e = yaffine o paffine jq affine. As in the
proof of Lemma 4.3.6, we use

P (X o Kafﬁne _ Z Z a az ( /3+vX) ° Kafﬁne7

;SENO veNO
[Bl=p1 v|=p2

where aj, a, are the column vectors of the Jacobi matrix of xfi"e, that is,

(al)j — aﬂme Z a Xafﬁneaj nifﬁne.
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affine

We have ’8k x4l < he and from (4.235) we conclude that ‘3,- nj-fﬁ“e <
diam 7/ (2 |7|). This leads to |(a;) ;| < h. diam 7/ |Z|. Thus
: he diam 7\ ¥ h, O\
|3M (XOKafhne)| <C T 1~al’1’1‘L' <c(ccy— _ 7
7| diam @,
where C depends only on k and the global chart y. O
4.4 Inverse Estimates
The spaces H*(I") form a scale:
H*(") Cc H'(T'), fort<s (4.257)
with a continuous embedding: there exists some C(s, ) > 0 such that
lwll ey < CCs,0) ull sy » Yu e H*(T). (4.258)

Note that the range of s and r may be bounded by the smoothness of the surface (see
Sect. 2.4). In general, the inverse of this inequality is false.

Exercise 4.4.1. Find a sequence of functions (u,),cn € C* ([0, 1]) which contra-
dicts the inverse of (4.258) for s = 0 and t = 1, i.e., which satisfies

Jm | g1 go,1p) / lunll 220,17 = 00

However, for boundary element functions there is a valid inverse of (4.258), a
so-called inverse inequality, where the constant C depends on the dimension of the
boundary element space. In the following we will assume that the maximal mesh
width & is bounded above by a global constant /. For example, we can choose
ho = diam T or otherwise iy = 1 for sufficiently fine surface meshes. Recall the
definition of P} as in (4.67).

Theorem 4.4.2. Let either Assumption 4.3.17 or Assumption 4.3.18 hold. We have
forO0<m <4t allt € Gandallv € P} :

—L
Wlae@ < ChT ™ IVllgm ) -

The constant C depends only on hg, £, k and, for a polyhedral surface, on the
shape-regularity of the mesh G via the constant kg from Definition4.1.12. In the case
of a curved surface it also depends on the derivatives of the global transformations
¥ x~ " up to the order k.
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Proof. Owing to the h-independent equivalence of the norms |[[v| e, and
Il HE(zane) from Corollary 4.3.12, it suffices to consider the case of a plane
polyhedral surface.

Case 1: m = 0. Since IP’,: is finite-dimensional, all norms on ]P’,: are equivalent:
There exists a positive constant Cy such that for0 < j </

1Vl g7y < Ce VIl 2z Ve Pg.
With Lemma 4.3.6 or Lemma 4.3.13 it follows for all v € P} that
Wai@ < Cthiy ™ Plygig) < CeCihy 7 [PllL2@) < CeC1Cahy” vl 2 -
For the ||-|| g¢-norm, by summing the squares of the seminorm we obtain
—L
IVilaeqy = Chy™ VliL2ey » (4.259)
where C depends on £, k and the upper bound of the mesh width Aj.

Case2: 0 <m <{.For{ —m <n < { and |@| = n we write 3% = 98 928 with
|B| = £ —m and B < o componentwise. Then with Case 1 we have

< Chpt]* Py

m—L{
Ht—m(7) — =Cht |V|H”*“’”(r)'

o oa—f
ot =

Since || = n was arbitrary, this result and n — £ + m < m together yield

Vlgrn ey < CHI ™ Wl gn—etmry < CRZ ™8 [Vl o oy (4.260)
for an arbitrary £ — m < n < {. (Note that the constant C in (4.260) depends on
n,m, and £. However, n and m are from the finite set {0, 1, ..., £} and — by taking
the maximum over n and m — results in a constant C which does not depend on
n and m but on £ instead.) Inequality (4.259) for £ <— £ — m as well as Estimate
(4.260) finally yield the assertion

m
2 2 2
ey = Weeme + D Mine
n={—m+1

m
—{ 2 —/ 2
<CIR2" O Wta + D RO e
n=0—m+1

2(m—L 2
< CR2m Oy 3 g -
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The global version of Theorem 4.4.2 requires the quasi-uniformity of the surface
mesh G.

Theorem 4.4.3. Let either Assumption 4.3.17 or Assumption 4.3.18 hold. Then we
have forall t,s € {0,1}, t <'s, the estimate

Ve SE0: Ilasey < Ch ™ V] e - (4.261)

The constant C depends only on hy, p and, for a polyhedral surface, on the shape-
regularity and quasi-uniformity of the mesh G via the constants kg and qg from
Definitions 4.1.12 and 4.1.13. In the case of a curved surface it also depends on the
derivatives of the global transformations y, y~' up to the order k.

Proof. From Theorem 4.4.2 we have

2(t—s)
. 2
Wy = 2 s = € Q2™ Mlire = C(mgh) IVl o)

T€G T€G

< (Cad ™)1 Wl
a

Theorem 4.4.3 can be generalized in various ways. In the following we will cite
results from [75].

Remark 4.4.4. (a) Theorem 4.4.3 holds for all t,s € Rwith0 <t < s < 1or
—1 <t <0As=0(see[75 Theorems 4.1, 4.6]).

(b) Theorem 4.4.3 is valid for the space Sé”_l forallt,s €e Rwitht =0A0 <
s<1/20r—1<t <0As =0/(see[75 Theorems 4.2, 4.6]).

We will also require estimates between different L?-norms and discrete £7-
norms for boundary element functions and, thus, we again start with a local result.
Here we will always consider the situation where a Lagrange basis is chosen for P}

ont. X, = {ﬁ, 1€ l}é} denotes the set of nodal points on T. The Lagrange basis

(1/\7,) . of P,f satisfies
i€l

]/\7,' (i;j>=8,"j Vi,jetli.

A vector of coefficients w := (w;),.z is put into relation with the associated
k

polynomial w € IP’,Z:’ on the reference element by means of

Wi= Pw:= Zwil/\?i.

e T
1€L
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We define the “lifted” function

wi= Prw:=Zw,-N,- with N; = N, o y7!

i/t
1 Etk
analogously.

Theorem 4.4.5. Let either Assumption 4.3.17 or Assumption 4.3.18 hold. For all
T € Gandallw:= (w;) £ we have

i€L

Che [Wllez < [[PeWllp2r) < Che [[Wle2 -

The constants ¢ and C depend on the parameters qualitatively in the same way as
does C in Theorem 4.4.3.

Proof. From Lemma 4.3.6 or Lemma 4.3.13 we have

che Wl o) < W2 < Che [l oy with = wo ye.
£2(7) £2(7)

Since all norms are equivalent on IP’%, we have
i Wl gr+ry = IWllz2g) = Cr ||W||Hk+1(?) :

The equivalence of the H¥*! (¢)-norm and the [-]; | ;-norm follows from Lemma
4.3.1. Since W € Pf,

M1 = Wlgrni+ D W@ = DY W@ =Y (wil = Wl . (4.262)

ZEX ZEX iELZ

Since {{X; is finite, there exist positive constants ¢, C depending only on the
cardinality of X, i.e., on k, such that

clwle = [wlg = Cliwllge.
Combining all these results, we have thus proved that

Che Wiz < Wl 2@y < Che [[Wlle2 -

Corollary 4.4.6. Let the conditions from Theorem 4.4.5 be satisfied. Then

Che Wl pooiry < IWllL2(ry < Che Wl Loo(ry
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for all w € P. The constants ¢, C qualitatively depend on the parameters in the
same way as do ¢, C in Theorem 4.4.3.

Proof. If we combine Theorem 4.4.5 with the norm equivalence on finite-
dimensional spaces for w = (w;); e and w = P;w it follows that

IWllz2y = Che [Wlle2 < Che [[Wllgoo < Che [[Wl ooy -

Conversely, with the notation from the proof of Theorem 4.4.5 we have

. . . (4.262)
Wllzooy = Wl ooy < C Wl ga+is) < C'Wleyy = C' Wl

= C" wllgee = C" W2 -

Note that the constants in this estimate depend on the cardinality of X, i.e., on k.
From Theorem 4.4.5 we thus have the lower bound. O

The global version of Theorem 4.4.5 shows an equivalence between boundary
element functions and the associated coefficient vector. Let (b; ), be the Lagrange
basis of the boundary element space S. We define the operator P : RY — S for
w = (W)L, by

N
Pw = Zwibi.

i=1

Theorem 4.4.7. Let Assumption 4.3.17 or Assumption 4.3.18 hold. Then for all
we RN
chlwle < 1PWlL2qy = Ch|wle .

~

The constants ¢, C qualitatively depend on the parameters in the same way as ¢, C
do in Theorem 4.4.5.

Proof. Let w € RY be the coefficient vector of the boundary element function
w = Pw. For T € G we can associate a global Aindex ind(m,t) € {1,2,...,N}
on t with every local degree of freedom m € ;. We set w = (W¢m),, ai =

(wind(m,r))m i With Theorem 4.4.5 we obtain
2 2 2
IPWIZ 2y =D 1PeWlZ2iy < CH* D [IwellZ2 -
T€G T€g

The constant

M :=  max ﬁ{(m,r)ELf,Xg:izind(m,r)}
i€{l1,2,...,.N}
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depends only on the polynomial degree k and on the shape-regularity of the surface
mesh. It thus follows that

2 2
1PWI72y) < CMA? Wl -

The lower bound can be found in a similar way. O

Corollary 4.4.8. Let either Assumption 4.3.17 or Assumption 4.3.18 hold and let
(bi); 1 denote the nodal basis for the boundary element space S. Then

[16ill oo (ry < Ci. (4.263)

The constant Cy depends only on the shape-regularity of the mesh and the polyno-
mial degree of S.

IfS = Sé’ofor some k > 1 then
|bi ly1.00 () = I Vsbill ooy < C‘ﬂz:l for any T C supp b;. (4.264)

The full W1-°° (T')-norm is given by |||y 1,00y = max {”'”Loo(l") , |'|W1.oo(1")}
and hence .
I6i | 100y < C3h;'  forany T C suppb;. (4.265)

Proof. Lete; € RZ denote the vector with (e;); = 1 and (e;) ;= 0 otherwise, i.e.,
b; = Pe;, Let t C suppb;. The combination of Corollary 4.4.6 and Theorem 4.4.5
leads to .

16i ]| Loy < (@€he) ™" 1bill L2y < C /2.

Because b;|, = 0 forall t € G; with t ¢ supp b; we have proved (4.263).

For the proof of the second estimate we observe that — as in the proof of Theo-
rem 4.4.3 — it suffices to consider plane panels with straight edges. Hence Vgb; is a
polynomial on every panel 7 so that

n Cor. 4.4.6 Theo. 4.4.2 1
Che |Vsbhillpeory = WIVshillz@y = Chy bill2e

Theo. 4.4.5

CC |eil,2 =CC

from which the assertion follows. O

We can also analyze how far the constants in the norm equivalences depend on
the mesh width /4 in the case of the £# and L? (I")-norms with 1 < p < oo. Here
we will only require the cases p = 2 and p = oo and refer to [75] for the more
general case.
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4.5 Condition of the System Matrices

One of the first applications of the inverse inequalities is the estimation of the
condition of the system matrices of the integral operators.
Lemma 4.5.1. Let Assumption 4.3.17 or Assumption 4.3.18 hold. Let K be the sys-

tem matrix associated with the Galerkin discretization of the single layer operator
V for the Laplace problem. Then we have

cond>(K) < Ch™ 1.

The constant C depends only on the polynomial degree p and the shape-regularity
and the quasi-uniformity of the surface mesh G, more specifically on the constants
kg and qg from Definitions 4.1.12 and 4.1.13. In the case of curved surfaces it also
depends on the derivatives of the global transformations y, x ' up to the order k.

Proof. Since K is symmetric and positive definite, we have

Amax (K)

cond, (K) = oK)

In the following we will thus estimate the eigenvalues of K. It follows from the

continuity and the H~!/2-ellipticity of the bilinear form (V- Jo 1 H —1/2(1) x

H~'/2(T") — K that there exist two positive constants y and C, such that
Voo < Viwo < Cellulyoiogy — Yue HTV2(T).

From this it follows with Theorem 4.4.7 that

Kw, w Vw,w
Amax (K) = _omax % < Ch? (2—)0
w=(w;); RV \{0} ||W|| weS\0} [lwl|72(r
||W||2 -1/2
<cr?C max —2 O < cpc..
weS\{0} ||W||L2(F)

By Theorem 4.4.7 and Remark 4.4.4 we have for the smallest eigenvalue

K bl . V 9
o (K) = min Liyzz Lgm
w=(w;); ERN\{0} ||W|| weS\{0} ||W||L2(F)
lwl|%-
> Ch?y min w > C'h?yh.
weS\{0} ||W||L2(F)

Thus
Amax (K) //Xmin (K) = Ch_l

and the lemma follows. O
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Exercise 4.5.2. Show that the system matrix K associated with the hypersingular
operator also satisfies the estimate

cond, (K) < Ch™!

under the conditions of Lemma 4.5.1.

Remark 4.5.3. For the condition of the mass matrix M = ((bi.b;) o) _
1,]=

we have

cond, (M) < C.
Proof. Since
(w,Mw) = (Pw, Pw)Lz(r)
we can apply Theorem 4.4.7:
M . M ) A
&h? < min @ <  max M < C?h?,
weRN\{0} |w]|| weRN\{0} |w]||
from which we have the estimate of the condition with C = C2/¢2. O

Estimating the condition of system matrices for equations of the second kind is
more problematic, as the stability of the Galerkin discretization for these equations
is in many cases still an open question. If we assume that the /-independent stability
of the discrete operators is given, the condition of the system matrices for equations
of the second kind can be determined in terms of an A-independent constant in the
same way as before.

4.6 Bibliographical Remarks and Further Results

In the present chapter, we introduced spaces of piecewise polynomial functions
on the boundary manifold I', and established approximation properties of these
spaces, as the meshwidth / tends to zero, in several function spaces of Sobolev
type on I'. These boundary element spaces are, in a sense, Finite Element spaces
on the boundary surface I". We also presented a general framework for the conver-
gence analysis of Galerkin boundary element methods, in particular necessary and
sufficient conditions for the quasi-optimality of the Galerkin solutions to hold.

For reasons of space, our presentation does not cover the most general cases.
For example, the surface meshes upon which the boundary element spaces are built
did not allow for local mesh refinement or, more importantly, for anisotropic local
refinements for example in the vicinity of edges (see, e.g., [75, 87,234]).

Most of our results do extend to so-called graded, anisotropic meshes (cf. [104,
107, 108]). In addition, besides mesh refinement, analogs of spectral methods or
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even a combination of mesh refinement and order increase, the so-called hp-Version
BEM ., is conceivable (cf. [222] and the references therein).

Further, for particular classes of boundary integral equations, special choices of
subspaces may yield large gains in accuracy versus number of degrees of freedom.
Let us mention, for example, the case of high frequency acoustic scattering. Here,
the stability of the boundary integral operators depends, of course, on the problem’s
wave number but, in addition, also the solutions contain high-frequency compo-
nents which are smooth, but highly oscillatory at large wave numbers, and therefore
poorly captured by standard boundary element spaces, unless the fine scale of the
unknown functions on the boundary is resolved by sufficient mesh refinement. This
strategy may lead, however, to prohibitively large numbers of degrees of freedom.
A better approach may be to augment the standard boundary element spaces by
explicitly known, dominant asymptotic components of the unknown solution. In
high frequency acoustics and electromagnetics, in particular for BIEs obtained from
the direct method (where the unknowns are Cauchy data of the domain unknowns),
strong results on the asymptotic structure of the solution are available from geo-
metrical optics. These can be used to build boundary element spaces with no or
a reduced preasymptotic convergence regime at high wave numbers. We refer e.g.
to [5, 57, 153] for recent work on wave number independent Galerkin BEM for
acoustics problems.

In this chapter, and throughout this book, we focused on Galerkin BEM. We do
emphasize, however, that the alternative collocation BEM do constitute a powerful
competition; for collocation BEM on polyhedra, however, the theory of stability and
quasi-optimality is much less mature that in the Galerkin case. Still, since colloca-
tion methods do not require the numerical evaluation of double surface integrals,
they offer a substantial gain in accuracy versus CPU time.

For this reason, in recent years substantial work has been devoted to collocation
based BIEs for high frequency acoustic and electromagnetic scattering. We mention
in particular the work of O. Bruno et al. (e.g. [34,35,161]) which is a collocation type
boundary element method which combines incorporation of high frequency asymp-
totics with a degenerate coordinate transformation of the surface in the presence of
edges or vertices and a Nystrom type collocation procedure. The mathematical error
analysis of this method is in progress.

The a priori asymptotic error bounds for Galerkin BEM developed in Sect. 4.2
show that Galerkin BEM exhibit superconvergence in negative Sobolev norms on
I". This allows us, in particular, to deduce corresponding results for postprocessed
Galerkin approximations which can be obtained as smooth functionals of the solu-
tion. Importantly, the insertion of the Galerkin solution into the representation
formula is such a postprocessing operation. Therefore superconvergent pointwise
approximations of the solution to the underlying boundary value problem at interior
points of the domain result usually from Galerkin boundary element approxi-
mations. Note that our analysis in Sect.4.2 reveals the crucial role of Galerkin
orthogonality of the discretization in the derivation of superconvergence estimates
in negative order norms (indeed, for other discretization schemes such as colloca-
tion or Nystrom methods, such superconvergence results either do not hold or only
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with a much smaller gain in asymptotic convergence order). We finally note that
the superconvergence error bounds for the solution at points x in the interior of
both the domain €2 or its complement deteriorate as x approaches I'. Nevertheless,
this deterioration can be remedied and postprocessing procedures can be designed
to recover superconvergent solution values and normal and tangential derivatives
(required, for example, in shape optimization or uncertainty quantification) of arbi-
trary order from the Galerkin solution such that the superconvergence bounds are
uniform in the distance of x to the boundary I'. For the details, we refer to [213].






Chapter 5
Generating the Matrix Coefficients

In order to implement the Galerkin method for boundary integral equations, the
approximation of the coefficients of the system matrix and the right-hand side
becomes a primary task. The integrals are of the form

/b,- (x) b; (x) dsx. /b,- (x) r (x) dsx (5.1)
r r
and

[50 [kxyy=x0 @ dsds. [ 50 [koyy—0r @ dsds.

r r r r 52)
where b; denotes the basis functions of the boundary element space and r is a
given function (right-hand side). Note that the basis functions are real and therefore
complex conjugation becomes obsolete.

The aim of this chapter is to develop and analyze problem-specific integration
techniques in order to approximate these integrals. Note that the integrals in (5.1)
do not contain any singularities, assuming that the right-hand side r is sufficiently
smooth on every panel. Furthermore, the number of non-zero integrals in (5.1) is
proportional to the dimension of the boundary element space (and not the square of
the dimension) because the basis functions are only locally defined.

First we will define a class of functions, the kernel functions, and derive their
characteristic properties (in local coordinates). All the kernel functions that we have
dealt with so far are part of this class as are kernels that appear in connection with
linear elasticity. Subsequently, we will introduce suitable variable transformations
that render the singular integrands analytic. This, in turn permits the numerical
approximation of the integral by means of standard quadrature methods. These
coordinate transforms are applicable to any integral operator arising in the bound-
ary reduction of strongly elliptic partial differential equations in R3 (see [137]).
They will not depend on the explicit form of the kernel function. This implies that
the numerical integration in the computer program can be realized in an abstract
manner.

S.A. Sauter and C. Schwab, Boundary Element Methods, Springer Series 289
in Computational Mathematics 39, DOI 10.1007/978-3-540-68093-2_5,
© Springer-Verlag Berlin Heidelberg 2011
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We will conclude this chapter with an error analysis. First we will analyze the
local quadrature error depending on the order of the quadrature, after which we will
estimate the effect this has on the entire discretization.

If not explicitly stated otherwise we will restrict ourselves to the case d = 3 and
two-dimensional surfaces I' in the entire chapter.

Remark 5.0.1. In certain special cases (plane, right-angled panels, kernel func-
tions for the Laplace operator) the integrals in (5.1) and (5.2) can be evaluated
exactly (see [157]). However, we prefer the ansatz via numerical quadrature, as this
allows for a much larger class of integral operators and is also easier to implement.

Note: Readers who are more interested in the quadrature formulas and in the
required number of quadrature nodes than in the analysis and derivation will find a
compact summary of these in Sect. 5.2.4 and Theorem 5.3.30.

5.1 Kernel Functions and Strongly Singular Integrals

The properties of an integral operator of the form

(Ku) (x) :=/Fk(x,y,y—X)u(Y)dSy

are characterized by the properties of the kernel function k and the smoothness of
the surface.

5.1.1 Geometric Conditions

In this section we will summarize a set of conditions imposed on the surface and
the boundary element mesh. Most of the applications satisfy either these conditions
or some weakening of them. The relevant cases in which the conditions can be
weakened will be duly noted.

As before we use the notation G := {ry,...,7,} for the boundary element
mesh and y; : T — 7 for the parametrization over the reference element (unit
square/triangle).

Assumption 5.1.1. The surface mesh G is regular in the sense of Definition 4.1.4.

We assume that the functions y., y; are analytic. The details can be found in the
following definition. The differential operator (v, V)™ that appears in the definition
is defined for a vector v € R? by

vV fe= (’Z) ykym=k gkgm=k 1 (5.3)
k=0
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Definition 5.1.2. Let © € G. The parametrization y, : T — t is analytic if there
exists an open, complex neighborhood 7* C C x C of 7 in which y; can be
extended analytically, i.e., for all z =(z1,z2) € ©* there exists a neighborhood
U (z) C 7* such that

xAWﬁ=XfW_LVYX”n Vwe U (z).

i!
i=0

The extension is again denoted by .
Assumption 5.1.3. For all t € G the parametrizations y. : T — T are analytic.

The integrals (5.2) over I' x I will be split into a sum of integrals over 7 x ¢,
where t,¢ € G. The quadrature error will depend on the angles between adjacent
panels and the distortion between the surface and the Euclidean metric. We will
employ Assumption 4.3.29 and the constants therein to quantify this influence. The
discretization parameter for the boundary element method is the diameter /4 of the
largest panel of a surface mesh. The error estimates from Chap. 4 describe quantita-
tively at what rate the error goes to zero as i — 0. Therefore it is essential for local
quadrature error analysis that the behavior of the parametrization with respect to the
panel diameter is properly understood. In order to describe this behavior we define
the quantities e1, 2,0 : T — R as follows:

e1 (X) = (|01 ®)[|, e2(X) := [[02xz K|,
(01 xz X), 021 (X))
101 1z R 1920 R

cosf (X) := (5.4)

For plane triangular elements, eq, ez, cosf and the ratio e;/e; can be easily
estimated by geometric terms related to the triangle.

Example 5.1.4. Let t C R3 be a plane triangle with vertices A, B, C and interior
angles ., B, y. The reference triangle is denoted by S and has the vertices (0, 0)T,
(1,0)T, (1, 1)T. Then the mapping x. : S — t is given by

xr (X) = A + mx
with the 3 X 2-matrix
m:=[B—A,C—-B].
We have

(B—A,C—B)

e1 = [B—A[, e, =||C—BJ, cosf = .
B—A|C—B

In terms of the smallest interior angle of the triangle t

0o (t) := min{a, B, y} (5.5)
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we obtain the estimates

|B—Al  siny - 1

<0 <m—6 and sinfy < - _
o=v =77l Aand ST =3ETR T Sina — sinfo

This means that for triangulations that only consist of plane triangles, the quantities
e1/ez and cos 0 depend only on the minimal interior angle but not on the refinement
of the triangulation.

Example 5.1.5. Let I be a surface and Gy a triangulation with (curved) triangles
whose diameter is of order 1. We can construct a refinement of Go as follows. For
everyt € Gy we generate a plane triangulation G; of the reference element t, which

is then mapped by y; onto T, i.e., G; := {)(, (7):T e é,} The refinement of Gy is
given by

G = {X, ():VieG, Vie go}
(see Fig.5.1). For a triangle T € G with t C t € Gg the vertices and interior

angles of the triangle T := y;' (v) are denoted by A, B, C and «, B, y. Then the
parametrization of T is given by

Xz (%) = x: (A + mX)
with the 2 x 2-matrixm = [B — A, C — B]. It follows that

e ®) = (B—A,G R B-A)"?, ek = (C—B,G, (%) (C—B))"?
(B—A,G; (%) (C—B))

e1(X) ez (%)

cosf (X) =

L
Xi

X?fﬂne

~
t

T

Fig. 5.1 Refinement of the reference element induces a refinement of the surface mesh
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with the Gram matrix
G; (%) := (Dy: (A +mX)" (Dy; (A + mX))
and the Jacobian D y;. Clearly, the smallest and largest eigenvalues of this matrix

can be bounded below and above by Ayin and Amax respectively, while these are
defined by

.Gt (X .G, (&
0 < Apjn := inf inf inf w < supsup sup (& t(;() &)
redogeiteR2\(0} |8 100 xei ker?\(0} £l
= Amax < OQ.

Note that Amin, Amax depend only on the coarsest triangulation Gy and, in particular,
are independent of the refinement of G. Hence it follows that

Amin sin 90 )\'max
—— <ei/ex <

Amax ™ Amin sin 0

with [see (5.5)]
0o = inf{eo (F):VieG, Ve go}.

For the term cos 6 (X) we obtain

(my, G; (X) my)

(i, G, (}) 1)/ (o, G, (%) o) '/2

cosf (x) =

withm; = (B—A)/|B—A| and my = (C — B) / ||C — B||. With the function 6,
from (5.5) we have
[(my, my)| < cosby (7) < 1.

We define the compact set D = {(£,8) € So x Sz : (£,¢) < cos b (T)}. Since
Gy (X) is positive definite, the Cholesky decomposition of G; (X) exists, i.e., there
is an upper triangular matrix R = R; (X) with G; (X) = RTR. This results in the

estimate RER
|cos @ (X)| < max |<li ol 5 <
0D (RE, RE)"? (RE,R¢)"
The equality on the right-hand side only holds for linearly dependent vectors RE =
c¢R¢, ie, &€ = cC with ¢ € R. These, however, do not lie in D and it follows that

the quotient in (5.6) will always be strictly smaller than one. Since D is compact, it
follows that

(5.6)

lcos 6 (R)| < |cos 6" (x)| < 1

with 0 < 6* (X) < 7. This estimate is valid for every X € S and from the compact-

ness 0f§ we again deduce the existence of a 0* (0 < 0* < 7) depending only on
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6o (%)) Xt and Amin, Amax, Such that

sup [cos 6 (R)] < [cos 0*] < 1.
%S

5.1.2 Cauchy-Singular Integrals

We have shown in Sect. 3.3 that all kernel functions G (x —y), y1xG (x —y) and
71,yG (x —y) with G from (3.3) are improperly integrable. For other kernel func-
tions (Example: Elasticity) this is not the case. As all quadrature methods in this
chapter can also be applied to Cauchy-singular kernel functions without being mod-
ified, we will extend the class of kernel functions. The spatial dimension is denoted
byd =2,3.

Definition 5.1.6. The kernel function k is Cauchy-singular if the Cauchy principal
value

p.v./ k(xyy—x) f(y)dsy:= lim k(xyy—x) f(ydsy VxeTl
r 20 JT\B,(x)

exists for all functions f € L (T") that are Holder-continuous with exponent A > 0
in a local neighborhood of x.
Remark 5.1.7 is a direct consequence of the definition of improper integrals.

Remark 5.1.7. Forweakly singular kernels k the Cauchy principal value coincides
with the improper integral.

Example 5.1.8. Letd = 2 and T’ = (—1,2). The kernel functionk : T’ x I' — R,
k (x,y) = 1/ (x — y) is Cauchy-singular for x € T, but not for x € {—1,2}. We
have

SO 4 =p.v./ Mary+f(x)p.v./ o
X=Yy r xX—=y rx—y

Let f be Holder-continuous with exponent A > 0. Then |(f(y) — f(x))/(x — y)|
< Clx — y|A_1 represents an improper upper bound of the first integrand. The
second integration yields for x € T" and a sufficiently small &

1 e |
p.v./ ——dy = lim (/ dy —I—/ dy) (5.7)
rx—y e20\J1 X —Yy x+e X =Y
92—
= lim (loge —log (1 + x) + log (2 — x) —loge) = log x‘
£—0 14+ x
This proves the representation
X 2—
L0y [ LDy 4 13y 58)
rx
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If x is a boundary vertex the integral diverges, since in (5.7) there is only one
(loge) term. Note that the function p.v. fr fO)/C=y)dy : T' - Rin(58)
has logarithmic endpoint singularities for x = —1,2.

Exercise 5.1.9. Let T' = (—1, 1) x (=1, 1). Show that the functionk : T X_F - R,
k (x,y) := (x1 — y1) / |x = y|°, is Cauchy-singular on T x T but not on T x T.

Efficient numerical quadrature methods are defined on a reference domain and
are then transferred to other domains via pullbacks. For this it is necessary to decom-
pose the twofold integration over I" into a sum of integrals over pairs of panels and
then to transform the integration over a pair of panels into a twofold integral over a
reference element. Both steps can be complicated for kernel functions with strong
singularities and are derived in the following. The conditions imposed on the kernel
function and the associated integral operator will be specified in the following. The
general boundary element space on I' for a surface mesh G is again denoted by S.

Assumption 5.1.10. The kernel function k is Cauchy-singular. The associated inte-
gral operator

(Ku) (x) := p.v./rk(X,y,y—X)“(Y) dsy

is a continuous operator K : H* (I') — H " (T") for some u € {—1/2,0,1/2}
and a continuous mapping K : S — L? (T).
The boundary element space S is embedded in L? (T') and L™ (T").

Remark 5.1.11. The condition K : S — L? (T") allows the decomposition of the
outer integral

(Ku,v)p2(ry = Z (Ku,v)2() YueS, Vvel?T), (59

€@

where here (-, ) 2(ry and (-,-)p2(y) denote the usual L* inner-product and not the
continuous extension to dual pairings.

Remark 5.1.12. The integral operators (V, K, K') for the single and double layer
potentials from Chap. 3 satisfy Assumption 5.1.10 with p = —1/2,0,0. For p =
—1/2, this follows from Theorem 3.1.16 and the continuous embeddings S —
H=Y2(T) and HY? (T') < L2 (T"). For n = 0, this follows from Corollary 3.3.9
and the continuous embedding S — L (T').

For the hypersingular operator we use the representation from Theorem 3.3.22
as well as the property curlp a o ¢, curlp s op ¥ € L™ (T) for all ¢,y € SP° (see
Definition 4.1.36). Combining this with previous results we obtain

bw (1/” (p) = (V CllI'l]",A,zb v, CllI'l[‘,A,() (p)LZ(I‘) +c (171/” fﬂ)Lz(p)

= Z {(V curlpa,2p ¥, curlra0 9) 2 + (V. o) Lz(,)}

T€g
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with the integral operator V for the single layer potential and

(V) (x) :=c [ G-y ¥ (A nx),APn(y)dsds,  VxeTae
r

The fact that the integral operator can be localized is, for Cauchy-singular ker-
nel functions, a consequence of the locality of the Cauchy principal value. The
restriction of the integration to one panel t € G leads to the definition

(Kru) (x) := p.v./k(x,y,x—y)u(y) dsy. (5.10)

Lemma 5.1.13. Let Assumption 5.1.10 hold. Let u € L* (T') and u|, € C! (x) for
all T € G. Then we have:

(a) Foreveryx €t € G, (5.10) is finite.
(b) Forx & T the Cauchy principal value coincides with the Riemann integral .
(c)
(Ku)(x) = > (Ku)(x)  Vxereg. (5.11)

T€G

Letx € t € Gandu € L™ (") with u|, € C! (7). We can find an g9 > 0 with
I'NB:(x) =t N B (x) forall 0 < ¢ < gp. Since u is differentiable in t N B, (x),
the Cauchy principal value p.v. [ B.(x) k (x,y,x—Yy)u(y)dsy exists. The local
definition of the principal value property and the boundedness of the integrand on
I'\ B, (x) together yield that

pv. / k(x,y,x—y)u(y)dsy

exists for x ¢ t as a Riemann integral and for x € 7 as a Cauchy principal value.
Summing over all T € G gives us the representation

(Ku)(x) = > pv. / k(x,y,x —y)u(y)dsy. (5.12)

T€g

O

In Sect.5.3 we will discuss efficient numerical integration methods for the

approximation of integrals of the type [, k(X,y,y—xX)u(y)v(x)dsydsy.

Lemma 5.1.13 and Assumption 5.1.10 show that this decomposition is unproblem-
atic for Cauchy-singular integrals.

Corollary 5.1.14. Let the assumptions from Lemma 5.1.13 hold. Then we have for
allve L?(T)
(Ku, V)LZ(F) = Z (K;u, v)Lz(,)

T,t€G
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with

/ V(x)k (X, y,y —X)u(y) dsydsg T#t,
Xt
(K[M,V)LZ(T) =
/V(x) p.v./k Xy y—x) u(y)dsydsy v =t.
T T

5.1.3 Explicit Conditions on Cauchy-Singular Kernel Functions

In this subsection we will formulate explicit conditions that describe the analytic
properties of the kernel functions (Assumption 5.1.15) and guarantee the existence
of the Cauchy principal value (Assumption 5.1.19).

Assumption 5.1.15. The kernel function has the representation

b

— z

by =l Y (Jal. ). VeyeTa=y-xx £y
i=0

(5.13)
with s € Z and b € N. The functions k; (X,y) and A; (r, ) satisfy the conditions:

1. For0 <i < b, A; is analytic on (0, pg) x Uy where Uy is a neighborhood of the
unit sphere S, and pg > 0.

2. ||lz|| ™ 4y <||z|| , ”;—“> is improperly integrable in every two-dimensional, bounded
neighborhood of the origin.

3. The coefficient functions k; are contained in L*° (I" x ') and are uniformly,
continuously differentiable on smooth parts I'; x T'y of I' x I". The order of
differentiation depends on the smoothness of the surface pieces I'; x T'y. If these
are analytic then the coefficients are also analytic.

We note that practically all kernel functions that are derived by integral equation
methods from either scalar elliptic boundary value problems (in R?) or systems
thereof have the form (5.13). For a detailed analysis of fundamental solutions of
partial differential equations we refer to [97, 139]. The assumption b € N in (5.13)
guarantees that at most finitely many terms exist that are not improperly integrable.
It should be noted that the representation (5.13) is by no means unique.

Example 5.1.16. The fundamental solution G from (3.3) is of the form (5.13) with
s=1,b=0k9=1and

1 or(b&)a—alEly)

4 +/det A (1N

The kernel function of the classical double layer potential also belongs to the
introduced class of kernels.

Ao :Rs9 xSy —> C, Ao (r,§) =
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Example 5.1.17. The kernel of the double layer potential is given by
ViyG (x—y) =y13,6 (x—y) +2(n,b) G (x—y).
We use (3.30) and obtain

1 A7lz

—— = " 1R with |[R@|=<Clz|".
4n Vi A 2l ( IR @) ]l

V,G (z) =

It follows that

b
by = fal Yow o (1 o)

2 2]
withs =2, b =6,

Vi=0,1,2: (X,¥) = k43 (X,¥) = 041 (y),
Vi=0.1.2: 4 (1) = &/ (47 VAA IEIR). Ares (n§) = 12 ARCH);4

and i (x,y) = 2 (n(y),b), 4¢ (r,§) = r>G (r§).
The representation can be simplified for the Laplace operator and the parameters
can be chosenass =2, b =3, k3 = A3 =0,

Vi=0,1,2:k; (x,y) =0;11(y), A (r§):=—&/4n).

Exercise 5.1.18. Let G be the fundamental solution from (3.3). Show that the kernel
functions
Y1xG (x—y), Y1x71yG (X —Y)

belong to the introduced class of kernels.

It is shown in [139] that, for kernel functions of elliptic differential operators of
second order in R3, the order of singularity s in (5.13) is an integer and satisfies
s < 3. The case s = 3 occurs for the kernel function y;xy1,G (x —y) with G
from (3.3). We have, however, shown in (3.3.22) that the (hypersingular) kernel
function can be regularized by means of integration by parts. Similar regularization
techniques also exist for the integral operators of elasticity (see [127, 169]).

Kernel functions that satisfy Assumption 5.1.15 do not necessarily have a Cauchy
principal value. We have to require that the order of singularity s satisfies s < 2
and if s = 2 it also has to satisfy an antisymmetry condition (see also the parity
condition, e.g., in [137, (7.1.74) and Definition 7.1.3]).

Assumption 5.1.19. The kernel function satisfies Assumption 5.1.15 with s < 2. In
the case s = 2 let there exist a decomposition
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z z Z
A ,— | = Ao — A ,— 5.14
’(”Z” ||z||) ”°(||z||)+”z” (”Z” ||z||) G149

for 0 <i < b with functions A;j 0 (§) : So - K and A;i;1 (r,§) : Ry9 xS, - K
that have the same analytic properties as A; and satisfy

Aio (§) = —A4i0 (—§)
forall & € S,.
Kernel functions that satisfy Assumption 5.1.19 are called antisymmetric.

Remark 5.1.20. Improperly integrable kernel functions satisfy Assumption 5.1.19
with Ai,O = 0.

5.1.4 Kernel Functions in Local Coordinates

In order to investigate the kernel function in local coordinates, it suffices to analyze
an arbitrary term in the sum (5.13). Therefore we assume that the kernel function is
given by

k(x.y.2) = 2]~ k (x.y) A (||z|| , ﬂ)

and satisfies Assumption 5.1.19. We set

KED =k ® .0 @)@ -2 ®), YR eixi:x#§ (5.15)

and, for the analysis of the behavior of k in local coordinates, we distinguish
between three cases:

(I) T, 7 touch each other in at most one point.
(I1) The intersection T N7 is a common edge.
(IIT) The panels are identical T = 7.

With regular surface meshes one of the above-mentioned cases always applies
for two panels 7,¢ € G. Should there be any hanging nodes the situation can be
reduced to one of the three above-mentioned cases by appropriate decomposition.

Case I: For T Nt = @ the kernel function is regular and the analytic properties on
the reference domains follow from the analytic properties of the transformations y.
and y;. We therefore assume in the following that T N7 = p. In local coordinates
we obtain for the difference variable z = y — x the representation

2= (¥)— x (X). (5.16)
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Without loss of generality we assume that y; (0) = y; (0) = p. Clearly, we have
z = 0 if and only if X = § = (0,0)T. Thus, in the case under consideration k is
analytic outside of ||X|| + ||¥|| < & with an arbitrary ¢ > 0 and it suffices to analyze
the singular behavior of k in an arbitrarily small neighborhood of 0. If we replace
x- and y; in (5.16) by their respective Taylor expansions about 0 we obtain

3 . V)" 1 (0) — (X, V)" x2 © (5.17)
m=1

m!

We interpret (X, §) as a vector in R* and introduce four-dimensional polar coordi-
nates
x.y) =ré (5.18)

with & = (X,¥) / [|(X,¥)|| € S3. If we insert this into (5.17) we obtain

2=rY "l (€) = ray (r.§) (5.19)
m=0
with
m+1 m—+1
(€)= (624. V)™ 1 0) = (512, V)" 4= (O £i=(6.8)), 1=i,) <4

(m 4+ 1)!

The function a; is analytic in (0, p1) x U; where U is a neighborhood of the unit
sphere S3 and p; > 0. By Assumption 4.3.29 and the bi-Lipschitz continuity of y;,
Xz there exist ¢, ¢, ¢ > 0 such that

rllay (r, 9l = llray (r, Ol = llzll = lly = x|l = ¢ (ly — pll + lIp — xI)
Zc(llxe 8 = 2 O + [lxe ®) = x= @D = ¢yl + Ix[D) = ér

and therefore a; does not have any zeros in (0, p2) x U, where U, is a neighborhood
of S3 and p, > 0. It follows from this that as 5 (r, &) := |lay (r,£)|* is analytic for
all s € R.

Therefore the quotient z/ ||z|| = a; (7, &) az,—1 (, ) is also analytic in (0, p2) X
U,. By combining these representations we obtain

z
1zl

where a3 (7, §) is analytic in (0, p3) xUs with p3 > 0 and a neighborhood U3 of S3.

nzn‘sfi(nzn, )  Say, (r8) 5.200

Case II: The intersection E := T N7 is a common edge. Without loss of generality
we assume that the parametrizations y., x; satisfy the relation

) =x(@) Y& elo1].
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Hence the difference
2=y-x=1 )~ 1 X
is zero if and only if the three-dimensional relative coordinates
y1— X
Z2:=(21.22,.23)7 := V2
X2
are equal to zero. In these coordinates the difference z has the form

2= 1 (5~ ().

We introduce three-dimensional polar coordinates Z = r§ with r := ||Z|| and § =
Z/||Z|| € S» and expand z with respect to Z about zero

o {E).9) 1) - @0)" e (3)
Z=y (zl+x1 Z < § > Om! 262

=7 Y My (£1.8) =: b (%1.1.8)
m=0
with m+1
(E)-9)"" 1) — @™ £ (3)
m+ 1) '

By Assumption 4.3.29 there exists a point on the common edge p = y; (0,0) € E
with

In ()ACI,E) =

b (a.r.8) = ly = x| = ¢ (Iy =l + Ip = xI)
(=2 + ]

)(t(
=c (=02 + 33+ (-0 +3 )

1 — 21)? "2
e
c(—yl ! +y§+x§) >

D

1 ()

v

2

Therefore b (X1, 7, §) does not have any zeros in (0, p4) x Uy where Uy is a neigh-
borhood of S, and ps > 0. From this we have that b 5 (21,7,&) := ||b (X1,7,8)|°
is analytic for all s € R.



302 5 Generating the Matrix Coefficients

As in Case I we deduce the representation

_ z _
2~ 4 (nzn,—) by (v1.18) 5.206)

||

with a function b3 ¢ that is analytic in /5 x (0, p5) x Us with neighborhoods /5 and
Us of [0, 1] and S5 respectively and ps > 0.

Case III: The panels t,t are identical. Since y is bijective, the difference
z2=y—x= y: (§) — xz (X)

vanishes if and only if the two-dimensional relative coordinates
A V1 —X
i=(120)
Y2 — X2
are equal to zero. If we expand the difference z about Z = 0 we obtain

o (B X
s=p - = 3 (B ) @,

m=1

We introduce two-dimensional polar coordinates Z = r§ with £ = Z/ ||z|| and obtain

z=rY "y &€ =rd R.1.€) (5.22)
m=0
with "
con  [EVT xe\ .
Im (X, §) = (W) (x).

We deduce from the bi-Lipschitz continuity of y. that

rlid &9l = lzll = X ) — x« ®l = c |y —X[ = c |zl = cr,

and therefore d (X, r,£) does not have any zeros in /¢ x (0, ps) x Us with neigh-
borhoods I and Ug of T and S respectively and pg > 0. From this we have that
das (x1,1,8) :=||b (x1,r,8)|° is analytic for all s € R.

As in Case I we deduce the representation

_ z _ N
k(x.y.2) = 2]~ A (nzn,—) ey R E) (5.200)

||

with a function d3 s that is analytic in /7 x (0, p7) x U7 with neighborhoods /7 and
U; of T and S; respectively and p7 > 0.



5.1 Kernel Functions and Strongly Singular Integrals 303

For Cauchy-singular kernel functions that satisfy Assumption 5.1.19 we can
further improve this result. We use the decomposition from Assumption 5.1.19

A (1t i) = o () + v (1 7)

with an antisymmetric Ag. By choosing A = Ag, s =2andkx = lor A(r,§) =
rAj (r, &) in ( 5.20c) we obtain

2]~ (Ao(” ”)+ Il 4, (n I o ”)) 2y R )+ ey R E).

Exercise 5.1.21. From the antisymmetry of Ao deduce the existence of a function
d3 > that is analytic in I3 x (0, pg) x Ug with neighborhoods Is of ©, Ug of S1 and
ps > 0, and satisfies

dsp (R, 1,8) = d3p (R, €) +rdss (R, 1,E), d3p (X&) = —d3 (X, —§)

with d3 2 (X, §) := d3 2 (X, 0, ).
Theorem 5.1.22. Let the kernel function satisfy Assumption 5.1.19:

(a) Then there exist functions d~3,2, c?3,1 that are analytic in I x (0,p) x U, and
there exist neighborhoods I of T, U of S1 and p > 0 such that

k(x,y.2) = r2ds, (X, 6) +r 'dsy (X, 1, §) and d3p (R.E) = —d3, (X, —§)

withx = y: X),y = y: X+rf),z=y—x
(b) Let b,, b be the basis functions on the reference elements. The integrand b (x)
bj 0] k (X,¥) g: (X) g¢ (¥) [see (5.15)] has the representation

253 A~ 153 A
r d3,2 (Xv g) +r d3,1 (X7 T, g)
with functions d3,», d3,1 that have the same analytic and antisymmetric prop-
erties. _ .
(c) There exists a function f that has the same analytic properties as d3,3, ds,1
from (a) and satisfies

kG X—2)+kE—2.8=r ' f & 1E). (5.23)

Proof. The fact that « is analytic in both variables combined with the fact that y; is
analytic passes on this property to
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K R) e ) = R RH) =R &R +5) = &R + (271 (.2)

—RER) + r<g,71 (i,r$)> — R &R + i K1, £)

with analytic functions i; and a (vector-valued) 1. Similar arguments can be
applied to the surface element g, as well as the basis functions 1;,- and b ; and, thus,
give us the statements of (a) and (b).

For c: If we substitute X — Z <— ¥ in the second summand of (5.23), apply the
already derived representations and use the fact that ds,; is smooth with respect
to the first variable, we obtain with Z = ré& for 12()2,5( —-7) + I€(§,9+ z) the
representation

r2dsn (R, —E) + 17V dag R, —E) + 1 2ds s (§,8) + 17 ds gy (3.7, 6)
= 2 (073,2 &, —£) + d32 (K — 2, g))+r—1 (073,1 K7, —E) + d3g (R — 27, g))
=172 (daa (k=) + daa (.9 + 1 (5.7 G 0)) +17 fo Rer8)
=: r_lf x,7,€).

5.2 Relative Coordinates

The numerical integration is defined on a pair of reference panels and is transferred
by means of a transformation to an integration over pairs of panels T x ¢. In general
we will assume that the conditions from Sect.5.1.1 hold. We distinguish between
four cases:

Identical panels

Panels with exactly one common edge
Panels with exactly one common vertex
Panels with positive distance

el

Relative coordinates for one-dimensional curves and interval partitionings are
due to [134]. In [211] general kernel functions in local coordinates were analyzed
and, based on these results, it was shown in [212] that when using simplex coordi-
nates the determinant of the transformation removes the singularity in the integrand,
which becomes analytic in a neighborhood of the original singularity.

Relative coordinates for triangular elements were introduced in [197] and [125].
Combining this with the pullback to the reference element was developed in [235].
Erichsen and Sauter [88] contains a compact summary of the required quadrature
orders, depending on the underlying operator, the order of approximation and the
norm in which the error is measured.
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5.2.1 Identical Panels

In order to generate the matrix coefficients the sesquilinear form is evaluated for
pairs b;, b; of basis functions. In the case of identical panels we consider the integral

/bi (x) p.v. / k(x,y,y—x)b; (y) dsydsx. (5.24)

For x € 7 and a sufficiently small g > 0 we have B, (x) NI" C tforall0 < & < g9
and the boundedness of the kernel function on 7 x (7\ B (x)) allows the definition

of the integral
I, := // ki (X,y,y —X) dsydsg
T JT\Be(x)

ki (x.y.z) :=b; X) k (x,y,2)b; ().

Let y; : T — 7 be the transformation of the reference element to . We set

with

ko (%) := ki Xz %) . = (3) - X () = x= X)) &2 (%) g (3) - (5.25)

B (}) := 1 (TN B, _(Xz (X)) denotes the pullback of the e-neighborhood of x
(see Fig. 5.2). Note that B, (X) in general does not by any means represent a circular
disc in the parameter domain. We will however show that the limit ¢ — 0 remains
the same if B, (x) is replaced by the disc B, (x).

Theorem 5.2.1. Let the kernel function satisfy the assumption (5.1.19). Let t € G
be parametrized by x € C'1* (%) with A > 0. Then

lim/[ ky (X,y)dydx = lim/[ ko (X,¥) dydx.
=0 J2 JR\B:.® &0 J2 JA\B:.®)

Fig. 5.2 Intersection of the & ball with the surface and deformed intersection in the parameter
domain
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Proof. We introduce polar coordinates (r, ¢) about X := xz' (x). The parametriza-
tion of the boundary d B (X) implicitly defines the function p : [0, o] X [-7, [ —

]Rzo by
e (5 + p e () ~x] = e

If we expand with respect to ¢ (see Exercise 5.2.2) and by using the implicit function
theorem we obtain p € C '+ ([0, go] x [, 7r[) and

0(0,0) =0, p(e,¢) = ep.(0,0)+ O (51"‘*) and, p; (0, ) = ”DXT( %) ( ff)nsj H
(5.26)
This leads to the decomposition

1 &
[ o =) [ s
T JT\B:(¥) T JT\B: (%) tJ—m Jp(e,p)

We will show that the second integral on the right-hand side converges to zero for
& — 0. The angular integration is split into [—, 0] and [0, [ and ¢ is substituted
in the first interval by ¢ = ¢ — 7. For the second integral in (5.27) this yields the
representation

T € R
ko (X, X471 (¢ d +/ k(%% + cos(p—m) d)d ey
/%[0 (/p(e,(p) 2 (X X r(smw))r r o 2<x X r(ﬂﬂ({p_ﬂ))) rdr)dedk

(e,9—7)
(5.28)
The expansion (5.26) implies that
p(e,p —m) =¢p: (0,90 — ) + O (81“%) =¢ep: (0,0) + O (SH_A)
=ple.p)+ 0 (81“) ,
which for the integral in (5.28) yields the representation
cos cos(¢p) A
/ / / kz x X+ r(mg)) +ky ( X — r(qin(;’)))) rdrdpdx
p(e.0)
p(e,p) ©
k x X —r(® rdrdedx. (5.29)
/ / /p(s,w _) 2 (sm((p)))

The kernel function in polar coordinates can be estimated as

’rkz (x x— r(“’i‘ﬁ))‘ <Cr!

Since |p (e, ¢) — p (6,9 — )| = O (¢'*) the second integral in (5.29) converges
to zero and we therefore only consider the first integral. The antisymmetry of the
kernel function in local coordinates (see Theorem 5.1.22) implies
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r (k2 (x %+ r(gi“;;g)) +ho (xx - r(gi“;gg;))) =0()
and therefore the first integral in (5.29) also converges to zero. O

Exercise 5.2.2. Prove the expansion (5.26).

This proves that (5.24) coincides with the limit of the integral

- 1 pX1 pl ph
I, :=/ / / ko (X,y)dydx
0 0 0 0
——

I§—%l>e

for ¢ — 0. It is our aim to represent the limit limg_,¢ 76 as an integral over a fixed,
e-independent integration domain with an analytic integrand. To achieve this we first
introduce relative coordinates (X,Z) = (X,y — X) that shift the singular behavior of
the kernel function into Z = 0. For now, let T be the unit triangle. The results for the
unit square will be summarized in Sect. 5.2.4.

Then we have

- 1 X1 1-X 21+x1—X2
T. = / f f ks (.7 + %) d3d (5.30)
0 0 —X1 —X2
lzll=e

The following two examples serve to illustrate the characteristic behavior of the
integrand as well as the strategy for its numerical treatment (see Fig. 5.3).

Example 5.2.3. Let k : (—1,2) x (—=1,2) — R be given by k (x,y) = (y —x)"".
For smooth functions u, v our aim is to evaluate the integral

2 2
18=f1v<x> f_ k (o) () dyds.

[x—y|>e

—1-x

Fig. 5.3 Relative coordinates for (x, y) € (—1,2) X (—1,2)
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In this case relative coordinates 7 = y — x yield

2 2—x
I, = / v (x) / “CHED ) ax. (5.31)
-1 —1—x Z
lzl=¢
For simplicity’s sake we set u(z) = 1 (in general u would have to be expanded
about 7 = 0). The inner integration can be evaluated explicitly and yields (for

e<min{2—x,1+ x})

2—x
1 2—
lim Sdz=m2"Y
e=0 ) _1_x2 1+x
lz|>¢

This example shows that the result of the inner integration has characteristic (log-
arithmic) singularities on the boundaries of the panel related to the outer integration
and that it therefore is not sufficient to only develop special integration methods for
the inner integration. Standard quadrature methods can thus only be used with a sig-
nificant loss in accuracy. In the case of two-dimensional surfaces it can be shown for
Cauchy-singular kernel functions that the result of the inner z-integration behaves
as ~log (dist (x, d7)). The strength of the singular behavior generally depends on
the order of singularity of the kernel function and significantly complicates the use
of weighted integration formulas. We will show in the following that the integrand
can be regularized by simply changing the ordering of the integration variables.

Example 5.2.4. Taking the auxiliary condition |z| > ¢ into consideration yields the
decomposition of the integration domain in (5.31) as given by

Changing the ordering of the integration variables in the subdomains D7 , yields

D‘fUD;:{ £<z<3 }U{ —3<z=<-—¢ }7

—l<x<2-z “l—z=<x=<2

and we obtain

3 1 2—z - 2
lim I, = lim / —[ v(x) dxdz—i—/ —/ v(x)dxdz (5.32)
&—0 &—0 & Z —1 -3 Z —1—z
————— S——

=D (2) 2 (2)

31 —£
= lim (/ Sy (z)dz+/ -h® (z)dz).
e—0 e Z -3 2
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The substitution z <— —z in the second integral gives us

35 ()= @ (=
lim 1, = lim @ =3,

e—0 e—>0 Jo d

By virtue of |h(2) (z) —h® (—z)| < Cz the integrand is bounded and the Cauchy
principal value coincides with the Riemann integral

lim I, =
e—>0

[3 h® () =h® (=2)
dz
0 Z

The integrand has a removable singularity for z = 0.

We will apply the one-dimension concept developed in this example to the
general situation (5.30) and first change the order of integration.
The integration domain is decomposed as

1<z <0 1<% <0 -1<z =<0
-1<2=7% U 21 <22 <0 U 0<z=<14+2z
—»<x =1 1<% =1 - <x =1
— <X <X D <kHh<X+u-2 0<% <Xi+z21—2
0<z1 =1 0<z1 =<1 0<z1 =<1
U —14+21 <% =<0 U 0<% =<2 U 71 <z <l
— <X =<1-2 0<X =<1-7% - <X =<1-Z
—22 <X <X 0<X <X 0<ir<Zi—Z2+ X%

with the auxiliary condition ||Z|| > ¢ into subdomains D;, 1 < i < 6. Note
that the z-variables describe the outer integration as in (5.32). As in the proof of
Theorem 5.2.1 we use the antisymmetry of the principal part of the kernel function
to regularize the integrand by means of mirroring. The subdomains D;, D5, D4 are
mirrored onto the subdomains D¢, D5, D3 by means of the substitution 2"¢" = —%
(see Fig.5.4). The X-variables in the other integrand are transformed by the substi-
tution X"¢"” = X — z"¢". More specifically, on the integration domain D; we use the
linear transformations

o) [ x X2\ x XD\ [(x+z
(ZSQV) (—Z) <ZE§3V>_(—Z) (zl(é‘)v)_( z )
xen x| (xR (x+z) (x5 X+z
GE)-C)CE) -0 08) -5
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Fig. 5.4 Subdomains D;,
1 <i <6, with
corresponding directions for
reflection
Dy Ds
Ds
D
) D,
Dy
and again denote the new coordinates by (x, z). This gives us
_ 1 p1 1 p%
T. :/ / / / ky R, —2) + k» (R — 3, %) dR | d
0 Jz; D J
~———
lzll>e
1 pz; 1 pX1—Z21+22
+/ / / / ky (% —2) + ko R —2,%) d% | d2
0o Jo 21 Iz
N———
lzl>e
0 1421 1+z; X1
+f / [ [ ky R R —2) + kr (R —2,%)d% | d2.
-1Jo 2 23
——
lzll=e

Owing to the smoothness of k with respect to the first argument and, in the case of
Cauchy-singular kernels, the antisymmetry of the kernel function [see (5.23)] for
|z|| — 0, the integrands behave as

ko (R X —%) + ko (R—2,%) = O (||2||—‘)

and are therefore improperly integrable. We set k) (X,2) = k» (X, %—1%) +
k> (X — Z,X). The limit ¢ — 0 then yields

_ 1ol [ p1 ok
I = lim I, =/ / ([ [ kS (%, i)dﬁ) dz (5.33)
&0 0 Jz; 2 Jo
1 p21 1 pX1—Z1+22
+/ / / / K R.2)dR | di
0o Jo 21 I
0 1473 1423 X1
+/ / / / kS (5)di | di.
-1Jo 2 23
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In the next step these three integrals are transformed onto the four-dimensional
reference domain

D:={0<w; =1,0=<w <w,0 w3 <wy,0=<wy <ws}.

The associated linear mappings 7; : D — Dj;, (X,z) := T;w are given for i =
1,2, 3 by the matrices m;:

1000 1000 100 -1

1-110 01-11 010-1
m; = , Imp = , Im3 (=

0001 0010 000 -1

0010 00 01 001 -1

We have det (m;) = 1 forall 1 <i < 3. From this we have for the integral (5.33)

I = Z[ [1 fowz /03 ki (m;w) dw.

i=1
The simplex coordinates (£, 11, 12, 3) transform the unit cube (0, 1)* onto D:

(w1, w2, w3, wa)T = (&, En1,Emin2, Eninanz)T.

Note that the determinant of the Jacobian of this transformation is equal to 3731,
and that we finally obtain the representation

I = Z[ [ [ [ Entnaky (Emy (1,1, mnz, mnan3)T) dndnzdnsdé.

(5.34)

It is proved in Theorem 5.2.5 that the integrand in this representation is ana-

lytic. The integral can therefore be efficiently approximated by means of Gaussian
quadrature with respect to each coordinate.

Theorem 5.2.5. The integrand in (5.34) can be analytically extended with respect
to all variables in a complex neighborhood of [0, 1]4.

Remark 5.2.6. The size of the complex neighborhood of [0, 1]4 in which the inte-
grand in (5.34) can be extended, is estimated in Sect. 5.3.2.3.

Notation 5.2.7. A function u : T Xx R x Sy has the property (A) if p > 0 and there
exist neighborhoods t™ of T and U of Sy such that u can be extended to a function
u* 1 " x Rso x U which is analytic on t* x [0, p] x U.

Proof of Theorem 5.2.5: We set b; := (b; o Xr) granduser = ||Z|| and & = Z/ ||Z].
The fact that the basis functions and the surface element g, are analytic in local
coordinates gives us the representation
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rkf %.2) =r (B,- ®)b; K-k G x—2)+b G-2)b; Rk (&-2,&))

= b (%) b; (ﬁ)r(ié(i,ﬁ—i)wé(ﬁ—i,&)) 2R (%, 1, E)

R:=b; (%) (D,E,-) G.rE) k& &—rE) +b; &) (D,;S,-) &, 1 E) k(& — rE, %)

and

WG —r§) —u@®
D) &, r&):=4" ifr >0,
— (£, Vu (%)) ifr =0.

Clearly, the functions D,b s D, b; have the property (A). From Theorem 5.1.22(c)
we thus also have the property (A) for the function rk;L in (X, r, £)-coordinates.
The integrand in (5.34) is therefore analytic with respect to every variable if we
can show that the transformation from (£, n)-coordinates to (X, r, §) is analytic. The
coordinate systems satisfy the relation

(%1, %2, 7 cosg, rsing)T = (X,2) = Em; (1,71, n1n2, mn2n3)’.

Form;, 1 <i < 3, we obtain the transformations

.
(5%’(1 —m +mmna), Emnay/1 + n3, arccot 773) i=1

T
(X1, 3.1 0T = (Ea Ent (1= my 4 12m3) . Eminay/ 1 4 13, arctan 773) i=2
2 2 1—ns T
§(1=n3).&m (1 =n2m3) . Emmz/m3 + (1 = n3)”, arctan ; i=3
3
(5.35)

that are clearly analytic with respect to all variables in (0, 1). For the determi-

nant of the Jacobian in (5.34) we have in (X, r, ¢)-coordinates 393, = r x
. . . A . —+ A

(entire function in X, ¢) and, thus, Property (A) is transferred from rk; (X, r (zi’sg))

to the integrands in (5.34). O

5.2.2 Common Edge

We consider two panels 7,7 € G with exactly one common edge E = TN 7. In
Lemma 5.1.13 it was shown that the integral

Tt = / bi ) b; (W) k (x.y,y — %) dsydsy
Xt
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exists in this case as an improper Riemann integral. Let the parametrizations y; :
t — tand y; : T — t be chosen in such a way that

xe(o) =x(@)  Vselo.1].

The integrand is given in local coordinates by

ks (®%,9) :=bi ®)b; )k (e R te 3o xe §) — 4 ®) g ®) g6 (§), (5.36)
i.e.,

Lons = / / ks (R, ) d§d%.
T Ji

We will again first consider the case that £ = 7 is the unit triangle. As before we
introduce relative coordinates

2= (1 — X1, 02, %)7,
in order to fix the location of the singularities of the integrand in Z = 0. Then
1 1-x1 21+ X1
o= [ [ [ [T kGina s smdian, 631
0 —X1 0 0

In general the result of the Z-integration, considered as a function of X1, has end-
point singularities in (0, 1). We change the order of integration for the purpose
of regularization. The integration domain in (5.37) can be decomposed into five
disjoint, four-dimensional polyhedra

5
loa =3 [ odiai
D;

i=1

with
-1<z1 <0 -1<z <0 0<7z1 <1
5 ~ A N ~ ~ A
UD"_ 0<z=<1+12z U 0= =1+ U 0<m=2u
1 - A A A A A A A A
P 0<z3<2-u —-21<z3=1 0<zz=<1-2z
-1 <% <1 3<x =1 <X <1-2;
0<z1 =<1 0<zi <1
71 <2<l 2<%, <1
U Lo us, S =2- .
0<z3=<22—2=1 —u<z3<1-2
- <X =<1-Z <X <1-7

The integration domains D;, 1 <i <5, are transformed onto the four-dimensional
unit cube as in the case of identical panels. For 1 < i < 5 the transformations
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T - (0,1)* = Dy, (£1,2) := T; (£, ), have the form

1 1
5) —mn2 (5) —N1N2n3
T ( =¢£ , T, =¢
n m (1 —n2) n mnz (1 —n3)
mns m
L—mn2 1 —n1mans
T3(§)=é mnz | T4(E)=E UEVE
n Nin2n3 n m
m (1 —1n2) mna2 (1 —n3)
(I —n1n21m3)
TS(S):E n1n2n3
n nmnz
n (1 —n2n3)

‘We have for the absolute value of the Jacobian determinant of 7;

£n? fori =1,
detT;| = !
|det 73] {E3n%n2f0r2§i§5.

Therefore for the integral I, we have derived the representation

oo = [ (ke Gumna. € (1= mum) 6m1 (1= 12)
(0,1)

+& 012 [ks (€. 61, € (1 — n1nans)  Emna (1 — n3))
+h3 (1 —mn2), & (m (1 —n2)) . §,6n1n2n3)
+hk3 (§ (L —mmn2n3) , §mnz2 (1 —n3) . §,6n1)

+k3 (5 (1 —nim2ns) .Em (1 —n2m3), €, Emn2)]} dndé.

(5.38)

The following theorem proves that the integrand is analytic with respect to every

variable.

Theorem 5.2.8. The integrand in (5.38) can be extended analytically with respect

to every variable in a complex neighborhood of [0, 1]4.

Proof. Using the same arguments as in the proof of Theorem 5.2.5 we only need to
show that the transformation from the (&, n)-coordinates to the (x1, r, £)-coordinates

is analytic. The coordinate systems satisfy the relation
(X1,7rcosesind, rsingsinf,rcosf) =T; (§,n).

For i = 1 we can explicitly determine the transformation
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§

X1

, Em i+ (L= n2)* + 13

o | arctan"%—;1 ’
2] n3

arccos —————-—
Vs +(1=n2)"+n3

which is analytic with respect to every variable &, 1,m2, 3. Fori = 2,3,4,5 the
coordinate transformations can also be given explicitly, which also supplies their
analyticity. Here we will refrain from a detailed analysis of the case 2 <i < 5. O

5.2.3 Common Vertex

We consider two panels 7,7 € G with exactly one common point p = T N 7. It was
shown in Lemma 5.1.13 that the integral

Tt = / bi ) bj (W) k (x.y,y — %) dsydsy
Xt

exists in this case as a Riemann integral. Let the parametrizations y, : T — t and
Xt 1t — t be chosen such that

Xz (0) = x: (0) =p.
As in the case of the common edge the integrand in local coordinates is given by
ks R.9) = bi R)b; §)k (e ®). 0 @) 20 §) — 4 R) g ®) &0 §) -
We introduce four-dimensional relative coordinates
7= (%1,%2,91,92)7,

in order to fix the location of the singularities of the integrand in z = 0.
First, let T =  again be the unit triangle. Then

1 pz21 pl p23
Iy = / / / / k3 (2) dz.
0 JO 0 JoO

In order to again be able to remove the singularity by means of a suitable multilinear
transformation, the integration domain has to be decomposed into

0<z1 <1 0<zz<1
0<z <% 0<7z4 <%
D1 UD; = —2="ly —A=
0<zz=<u 0<z1 =<7
0<Zz4<173 0<z <%
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For i = 1, 2 the transformations 7; : (0, 1)4 — D;,z = T; (§,n) are given by

Ty (€. n) ==&, n1,n2,m2n3)7
Ty (. n) ==& (2. man3, Ln)T.

The absolute value of the Jacobian determinant is in both cases equal to £37,. Thus
we have derived the representation

Ixi = [(o e E3 2 (ks (E.Em1. Ena. Emans) + k3 (Ena, Enans. E.Em1)} dEd.

(5.39)
The following theorem shows that the integrand in (5.39) is analytic with respect to
every variable.

Theorem 5.2.9. The integrand in (5.39) can be extended analytically with respect
10 every variable in a complex neighborhood of [0, 1]*.

Proof. As before, it suffices to show that the transformation from the (&, n)-
coordinates to four-dimensional polar coordinates is analytic. We recommend the
explicit derivation of the transformation formulas as an exercise for the interested
reader. O

5.2.4 Overview: Regularizing Coordinate Transformations

In this subsection we will formulate the regularizing coordinate transformations for
all occurring cases in a compact form. We assume that the kernel function satisfies
the assumption 5.1.19.For t,t € G, y; : T — tand y; : { — t denote the (analytic)
parametrizations over the reference elements. In the case of identical panels we
assume y; = j;, in the case of a common edge we assume y (s,0) = x; (s,0) and
in the case of a common point we assume y; (0) = y; (0). The integrand in local
coordinates defines

ks %,9) = bi ®)bj )k (re R, 2 @) e §) = 1 ®) g ®) g0 ),

and we set

Lo = / o / ks (&.§) d§ds.
z f

The unit square is denoted by @ and the unit triangle by S.
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L. Identical Panels
Il1Caset =7=9S

1 1 —n1m2ns
1— 1-—
Loy = / 53711712 ks | € n+ mn2 ks | m
(0,1 I —mn2ns 1
L—m L—n1 +mn2
1 1 —nins
Y ks |E m (1 —n2 + n2ns) AP N (1 —1n2)
1— 7’}17]2 1
m (1 —n2) n (1 =n2 + n2n3)
1 —n1n2m3 1
+ k3 é,.: m (1 - 772773) + k3 é,.: m (1 - 7)2) dﬁldﬂzdﬁ3d§
1 I —mn2ns
m (1 —mn2) n (1 —n2n3)
I2Caset =1 = @
a—=8mn A —=E&n)n
_ _ _ (I =&n)na (1—=&)ns
= [ g0-pa=eie | SR | SEOR
Em+ QA —=E&n)n E+0—=8ns
(1—=8&n (1 —E&n)n E+(1—=8n
Em+ QA —=En)n E+(0—-8ns (1 —E&n)n
Tl e ra—on TR lara—aon | TRl a-on
(A —=E&n)m (1=8n; Em + (1 —En)n
Em+ (A —=E&n)n E+(0—-8ns Em+ A —=E&n)n
1—=8n Em+ (A —E&n)n E+(1—=8ns
Tl a—em TR acen TR Ca—eom |79
E+(1—=8n (1 —E&n)m 1=8&n
II. Common Edge
IL1 Caset =1 =S
3
f'll'l3 3.2 Em
Irx = + k
' (0 4 E(1—mn1n2) S ks §(1—n1n2n3)
En (1 —1n2) Emmnz (1—1n3)
E(1—mmn2) & (1 —mninans) & (1 —n1n2n3)
ks Em (1 —mn2) + ks Emmnz (1 —n3) + ks Em (1 —n2m3) dydt
3 3 3 .

Eninanz Em Eninz
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2Caset =0, =8
E(1—n3)+n3 (I—=8)n3
_ 21 _ Ena Ena
Im_/(o,l)‘*g 1=81 5 E(1—n1—n3)+n3 ks §(1—n3) +n3
E(1—n1) Em
§E(1=m —n3) +n3 §m (1=n3) +n3
Enz 2 _ 3
Bl ca—y s [TEMOTENS e (= — ) 4
3 En (1 —m2)
(1 =&nu)ns §m (1 —m2—n3) + 13
3 3
k k dndé.
s Em+ 0 —=8&n)ns * Em (1 —mn3)+n3 nds
Enins Em
MI3Caset =S8, =0
EQ—n1—n3)+n3 E(1—n3)+n3
_ 201 E(1—m1) Em
’”"/m,l)ﬁ =03 e em | TRl alem
Eno Ena
5(1—n3)+n3 §m (1 —n2—n3) +13
2 _ En1 (1 —n2)
ks E(l—nl—n3)+n T (=5 ks Em (I —m3) +n3
3
Em+(1—€n1)ns Em (1=n3) +n3
Enins Em
(1—5721)773 Tk Em (1 —n2—n3)+n3 dnds.
3
11.4 Case =
(1-=8&ns+§ (1—=8)ns
xt = 2 o k 5772 k 5772
! [«),1)45 =Bl G lgn | TR era-gn
Em Em

5 Generating the Matrix Coefficients




5.2 Relative Coordinates 319

(I=E&n)ms +&m (I=8n)ns +&m

2.4 Enz 3
e =Em) ks (I=&n)ns ks (I=E&n)ns

¢ &y

(I—&ny)ns (I—=&ny)ns
+ ks §m2 ks § dnde.
(I —=&ny)nz +&m (I—=&ny)ns +&m
3 Eno

1II. Common Vertex

Ll Caset =Ff =S

Ix = /(O e E3m2 (ks (€. €1, En2. Enamz) + k3 (Enz. Enans. E.6m1)} dndE.

12 Caset=0Q, i=38

3 Em Em
Ioxi = RV UL N + 8% [ 512 [ anas.
Tt /(0’1)45 n2 1 k3 £112 3 £y &ks £ ndé&
Enans Enans Ens
I3 Caset =S, i=0
& £n2 £
Lo :/ £z { k3 §m2713 + k3 §m2773 + &%k, i dndé.
©,)* 3 Em Em
Em 3 Ena
l14Caset =1 = Q
3 Em Em Em
I‘L’X :/ 3 k gnl +k g +k é’lz +k Enl d d )
' (0,1)45 | ena | ena o | ens nd§

E &ns &ns 13
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5.2.5 Evaluating the Right-Hand Side
and the Integral-Free Term

In the following we will briefly deal with the approximation of the integrals
/b,- (x) b; (x) dsx. /b,- (x) r (x) dsx (5.40)
r r

[see (5.1)]. Let T be the reference element, y. the parametrization and 1;,- = bi|, 0
Xz» Fr := 7|, © xr. Then

/Fb,- X)b; X dsy =Y | bi ®)b; ®) g (®) dx.

reg’ T

For the unit triangle we transform the integral over 7 onto the unit square by means
of X = (&, £n) and obtain

A A 1 1 A A
5 @b G @ax= [ [ ebi(f)b(§)ecG)asan  can

The integrand on the right-hand integral is analytic, since the basis functions in &, -
coordinates are polynomials and, thus, analytic. We have already shown in Sect. 5.1,
proof of Theorem 5.1.22, that the surface element g (&, £n) is analytic.

In the same way we have under the condition r € L? (T") the representation

/ bi ) r (X dse =Y [ bi (®) 7 }) gc () d%
- .

T€G T

for the integral in (5.40) with

A 1 1 A
[b@n@e@ax= [ [ @ Eeaem G

If 7, (&, En) can be analytically extended to a neighborhood of the unit square then,
using the same arguments as before, the integrand on the right-hand integral is ana-
Iytic. However, in practical applications there are also cases in which the right-hand
side is not so smooth or even has singularities. In this case one should use adaptive
numerical quadrature methods that are able to suitably resolve the singular behavior
of the function 7;. Since such methods depend very much on the actual function
7 under consideration, we will refrain from a general description of these methods
and refer to [225] for an introduction to the problem.

Remark 5.2.10. If the reference element is the unit square the transformation X =
(&, &n) becomes superfluous. The results concerning analytic properties for the local
integrand can be appropriately applied.

If the direct method is used to formulate the boundary value problem as an
integral equation the right-hand side r is usually defined by an integral operator
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r=Af+Ksf,

and therefore integrals of the form

[b,- x)r (x)dsx = [ Az (x) b; (X) f (x) dsx
r r
+ /1“ b; (X)/rkz x.y.x—Y) f (y) dsydsx (5.43)

have to be evaluated. However, both integrals are of the type (5.40) and (5.2) and
can thus be regularized and approximated by the same techniques, assuming that the
function f is piecewise analytic. Otherwise adaptive methods have to be employed
that take into account the singular behavior of f.

5.3 Numerical Integration

We have shown that the coefficients of the system matrix and the right-hand side
can be formulated as integrals over [0, 1]4 with an analytic integrand. Such inte-
grals can be efficiently approximated by means of Gaussian quadrature methods
(see [225]). In this section we will present the appropriate Tensor-Gauss quadrature
for the approximation of these integrals. We will also estimate the minimal number
of quadrature points per spatial dimension in order to reach a given approximation
tolerance. We will later see that the quadrature order for some integrals has to be
chosen proportional to |log &|, i.e., the quadrature order goes to infinity for # — 0.
Therefore the error estimates have to depend explicitly on not only the mesh width
h but also the quadrature order.

The integrals in (5.1) are approximated with quadrature methods of fixed order
and so allow the use of simple quadrature methods.

Remark 5.3.1. If the continuous integral operators lead to symmetric bilinear
forms or Hermitian sesquilinear forms then the (exact) system matrices K of the
Galerkin discretization are, respectively, symmetric or Hermitian. Hence it suffices
to approximate and save the upper triangular part of the matrix K by numeri-
cal quadrature. Since the symmetry of system matrices is often an essential factor
for the convergence of iterative solution methods, this method also automatically
guarantees the symmetry of perturbed system matrices.

5.3.1 Numerical Quadrature Methods

In this subsection we will present simple quadrature methods for squares and
triangles, as well as Gaussian quadrature methods of arbitrary order.
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5.3.1.1 Simple Quadrature Methods

For € G, 7 denotes the reference element and y, : T — 7 the local parametriza-
tion. The integration of a continuous function v € C° (7) is transported back to the
reference element as

I (v) = [v(x)dx: [m) g (R) dX.

Here g (X) denotes the surface element and v := v|, o y;. The numerical quadrature

on the reference element is given by a mapping Q : C° (?) — K of the form

Q (V) = Za)i,nv(gi,n)

i=1

with weights w; , € R and nodes &; , € 7. The associated quadrature error E; :
C° () — K on the surface panel is given by

E:(v):=1:(v) — 0 (Vgc) - (5.44)
The space of all polynomials of maximal degree m € N was introduced in (4.23)
and denoted by P4 . In this section we will use the abbreviation P, = PA.

Definition 5.3.2. The numerical quadrature has the degree of exactness m € Ny
if the quadrature method on the reference element is exact for all polynomials of

maximal degree m, i.e.,
E:(v)=0 Vv e Py,.

The numerical quadrature is stable if

n n n
Zwi,n = |7 and Z |win| < Co Zw,n

i=1 i=1 i=1

Example 5.3.3. Let © be the unit triangle with vertices (0,0)7, (1,0)7, (1, DT. Then

0= 1Y

defines a quadrature formula with exactness degree 1 and Cg = 1.
A quadrature formula with exactness degree 2 and Cg = 1 is given by

v(1/2,0) +v(1,1/2) +v(1/2,1/2)
. .

oW =

Example 5.3.4. Let T be the unit square. Then

0(v)=v(1/2.1/2)
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defines a quadrature formula with exactness degree 1 and Cg = 1. Also

2

0w=7 Y vk

ij=1

with & = (1 — 1/«/5) /2 and & = (1 + 1/\/5) /2 defines a quadrature formula
with exactness degree 3 and Cg = 1.

Further quadrature formulas for the unit triangle and square can be found in
[226].

5.3.1.2 Tensor-Gauss Quadrature

For a continuous function f : [0, 1] — C we set

1
1(/)= [0 fdx.

Let (&;,n, wi,n);_, be the nodes and weights of the Gaussian quadrature of order n
with the weight function 1 on the interval [0, 1] (see [225]). The associated Gaussian
quadrature is given by

Q" (f) = winf (Ein)-

i=1
The quadrature error is denoted by E” (f) := I (f) — Q" (f) and satisfies

En(p):() VpG]Pzn_l.

For a function f : [0,1]* — C we set I(f) = f(o yt S (x)dx and for n =

(n,-)?:1 € N* we define the Tensor-Gauss quadrature of order n by

ny np n3 ng
Q" [f1= Z Z Z Z Wi ny @fny Oknz Ot ng | (gi,nl Ejnys ks gﬁ,n4) .
i=1j=1k=1£=1
(5.45)
Since all the derived integral representations from the previous section are of the
form I (f) with an analytic integrand f : [0, 1]* — C, the Tensor-Gauss quadra-
ture can be used for their approximation. As the numerical integration takes up a
significant part of the total computation time used for the numerical solution of
boundary integral equations, it is very important that a minimal quadrature order
n := (n;){_, be found to achieve a prescribed tolerance & > 0. The condition on n
reads

[E" ()= L()=Q" (NI =elfl. (5.46)
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The nodes and weights of the Gaussian formulas up to a high order can be pre-
computed, for example, with the program GAULEG described in [185, Sect. 4.5].
The output of the procedure “gauleg(a, b, x, w, n)” consists of the arrays x(1 : n),
w(l : n) of the nodes and weights of the n-point Gaussian formula Q" on the
interval [a, b].

5.3.2 Local Quadrature Error Estimates

We begin with quadrature error estimates for stable quadrature methods with an
exactness degree m. We will prove the convergence for i, — 0 and a fixed degree
of exactness. These can be used for the approximation of the integrals in (5.1).

The integrands in the regularized integral representations (see Sect. 5.2.4) are all
analytic. However, they do have poles close to (more specifically: in a complex
neighborhood of) the integration domain. In practical applications the occurring
kernel functions and their derivatives in local coordinates often have a very com-
plicated form, so that the quadrature error estimates, which often contain high order
derivatives of the integrand, are not suitable. We therefore use derivative free error
representations for analytic integrands for the estimation of the local quadrature
error. These are explicit with respect to the order.

5.3.2.1 Local Error Estimates for Simple Quadrature Methods

We will analyze the question whether the parametrization y; can be analytically
extended, which will form the basis for this discussion. We will restrict ourselves to
triangular meshes. The analysis for squares can be performed in a similar way. In
order to explicitly analyze the scaling of the size of the triangles we need to impose
suitable conditions on the parametrization.

Assumption 5.3.5. For every t € G the parametrization y, can be represented as
the composition of an affine mapping

Xz;fﬁne . RZ _ R2’ Xifﬁne ()A() = A+ m,ﬁ

and a mapping x : U — T with yaffre (3) C U,

Xe = xoxeme.
The image 7 := y () is a plane triangle in R?. The mapping y can be extended
analytically in a complex neighborhood U* withT ¢ U c U* C C x C and, in
particular, independent of the triangulation G.

There exists a positive constant Cx with the property: For all t,t € G with
TNt # @ we have

he/h < Ck with hy :=diamzt, h; := diam¢. (5.47)



5.3 Numerical Integration 325

Remark 5.3.6. The mapping y : U — T can be considered as a chart in an atlas
A for T. The choice of the chart from A depends on the panel t € G through
T C x (U). The chart y itself, however, is independent of .

Remark 5.3.7. From Condition (5.47) we have the existence of a constant ¢; > 0
that depends only on x so that

crhe <hg <ci'he (5.48)

affine

for the plane panels 7 := x4 o y~1 (7) and i := y¢ o y; 1 (¢). Furthermore, it

follows that "
hz/hi < c7?he/hy < Cx
with GK = CI_ZCK (see Remark 4.1.11).

The scaling and deforming behavior of the affine mapping " will be char-
acterized in the following by suitable geometric parameters. The vertices of the
image triangle T =y (%) are denoted by A., B;, C; and have a counter-
clockwise orientation. We call the associated interior angles o, B¢, yz. Then m; =
[B; —A;,C; — B;]. We set

0 := min{az, Br, Vi) - (5.49)

Proposition 5.3.8. Let m; be as in Assumption 5.3.5 and let Amax (Amin) be the
largest (smallest) eigenvalue of mIm;. Then

ch? < Amin < Amax < 2h% and ch? < g¥" := |/det (m{m;) < Ch2

with constants ¢, C > 0 that depend only on 0.

Proof. We set e; := |B; —A¢| and e, = ||C; —B;|| and note that ¢; < hz,
1 <i < 2. The upper bound for the singular values of m; results from

[(me&.me§)| = E2e? + 2616, (B: — Ar, C; — B;) + 23
< (&1]e1 + |E2] e2)® < 2h2||€|I

Elementary geometric relations on 7 and the binomial formula yield

(m:&, mc£) _

e1ez

e
—ZélngOSﬂ‘f‘Ezze_z
1
> (l—cosﬂ)( 128—14-5;8—2) > 25sin? émm{e1 ez} €112
e €1 2
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The estimate for the eigenvalues finally follows from

sin?

p Or . el e siny sino
Z>gin?Z and min!—, =} =min! —£, = > sin O;.
2 2 ey ey sino  sin y

affine
T

affine

The estimate for g2

is a result of the representation g =eq1eylsinfl. O

We consider stable quadrature methods with a degree of exactness m. The
stability implies that for all f € C° (?)

= max |/ Gl 2 loinl < Collfllcogs) -

i=1

Z CUi,nf (Ei,n)

i=1

1Q (Nl =

If we apply this estimate to the product g,V we obtain
10 (89| < Co lgehlco@) = Co lgelcogs) Pl coe) -
Lemma 5.3.9. Let Assumption 5.3.5 be satisfied, i.e., x: = x o )(‘;fﬁ"e. Then
||gr||c0(a < Ch,

where C depends only on the global parametrization and the quantity 0, from
(5.49).

Proof. The multiplication theorem for determinants yields

ge (0) = \/det (Dxo)T (Do) = |detme] \/det (G, o e %))
— |detm,| (g% o x4") (%) (5.50)

with the Gram matrix
G (W) 1= (Dy (W)T Dy (W) € R,
which depends only on the global chart y and g¥ := /detG,. From this we have
||gr||c0® < Cyl|detm,| < ChZ,

where C depends only on the global parametrization and the quantity 6, from (5.49).
O

Corollary 5.3.10. Let Assumption 5.3.5 be satisfied. Then the stability estimate
|E: ()| < ChZ Vo~ Vv eC’ (@)

holds for the error E from (5.44).
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Proof. The triangle inequality combined with Lemma 5.3.9 yields

Z win (Vgr) (Ein)

i=1

|E: (V)| =

/ v(x)dx — Q (0g0)| < |t] [Vl co) +

< CihZ |vllco) + CoCah? o) = (Cr+ CoCa) hZ IVl co) -

O

We now turn to the main error estimate for stable quadrature methods with an
exactness degree m.

Theorem 5.3.11. Let Assumption 5.3.5 be satisfied, i.e., x = y o yf. Let the
quadrature method be stable and let it have the degree of exactness m.
Then there exists a constant C, which depends on Cg, m, the global parametriza-

tion y and 0y from (5.49), such that for all functions v € Hmt () with m™ =
max {2, m + 1} the quadrature error satisfies the estimate

|Ec 0] < CH*2 V] ot (-

Proof. Let v := v o y, and observe that due to the degree of exactness we have
E; (v) = E; (Vgr) = E; (Vge — p) Vp € Pn.

Assumption 5.3.5 and the Sobolev embedding theorem imply vg, € C° (7).
First let m > 1. We choose p := (/I\m (f/gr)> o x;! with the interpolation m
from (4.73) and obtain

Corollary 5.3.10

EeGge—pl = Clige—T"Ggo)| , . =Clige —T" (o)

co@m —

Hm+1(7)

Lemma 4.3.1 n o
= Clige =T (g0

Hm (@) <C |Vg‘t|Hm+1(f) .

The Leibniz rule for products yields

|\7gr|§1m+1(%): Z [| 0% (9gr)||iz(?) = Z Z (Z) (049 (8% P gy)

le|=m+1 la|=m+1ll L=c L2(3)
m+1
<Cn ) Plar lgelemti—re
r=0
(4.204b), (4.215b) mtl -
< Culvllgmire ) W gelemiirg
r=0

where



328 5 Generating the Matrix Coefficients

()= (2)() w £om x

H2=ap

As in formula (5.50) we have

affine

gr = |detmq| gf o 47
and Corollary 4.3.7 leads to
|gr|cm+17r(f) < Ch.r[n+3—r7

where the constant C depends only on m, x, and the shape-regularity of the panel.
Thus

~ 2
Vgl grm+10y < CHE 2 V1 o)

and, all in all we have proved that
|Ex )] < CHE 2 vl gtz -

For m = 0 we replace the interpolation of Im (vg<) by the integral mean of vg,
and apply Poincaré’s inequality (cf. Corollary 2.5.12). O

Corollary 5.3.12. Let the assumptions from Theorem 5.3.11 be satisfied and let r €
cmt (7) and v € S with local polynomial degree p. Then

|Ex (vr)| < CHF P2 ooy 17l omt ) - (5.51a)
For two boundary element functions u,v € S we have
|Ex )] < O ull oy ] oy - (5.51b)

Proof. By Theorem 5.3.11 it suffices to prove ||vr||Hm+(r) < Clvlgre x
”C””L(r)' Wesetv =voy !, i =roy land7:= y~! (r) C R% Note that the
mapping y ! is independent of the mesh G. It follows from Corollary 4.3.12 that

I

+
m
2 ~~12
IV it oy < € D 1Pl sy
j=1

The Leibniz rule for products yields

D () = Y (%) (D*7) (D*7HF)

u=a
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With j = || we then have the estimate

D% G2y < C Vi@ IFllci@) -

Since ¥ is a polynomial of maximal degree p, we have ||V|| g« = 0 fork > p and
hence
IVl e = VIl ar ) -

All in all, we have shown that
V7Nl gyt 2y = C VI r @) 171l omt z) -

Finally, the transformation to the surface element (see Corollary 4.3.12) yields the
first assertion.

For the product of boundary element functions we obtain by (5.51a) and by using
Corollary 4.4.6 the estimate

|Ex )| < CHE ™ Nl g oy 19l o+ ) = CHE 2 Mt ooy (9l oy

1
< Chyt el gr @y VI Py -

5.3.2.2 Derivative Free Quadrature Error Estimates
for Analytic Integrands

In this section we will present the classical, derivative free quadrature error estimates
for analytic integrands, which are due to Davis [81, (4.6.1.11)]. Let Sp C C be the
closed ellipse with the focal points at z = a, b, semimajor axis a > (b—a)/2
and semiminor axis b > 0 (see Fig.5.5). The sum of the half-axes is denoted by

Fig. 5.5 Ellipses Sﬁl‘l with foci at —1, 1 and semi-axis sum p € {1.1,1.2,1.5,3}



330 5 Generating the Matrix Coefficients

p = a+b.Fora = 0and b = 1 we abbreviate 56)’1 by £°. A classical derivative free
error estimate of Gaussian quadrature for analytic integrands can be found in [81].

For f : [0,1] — C, Q" denotes the Gaussian quadrature with n nodes, scaled
to [0, 1], I (f) denotes the integral of f over [0, 1] and E” denotes the associated
error.

Theorem 5.3.13. Let f : [0, 1] — C be analytic with the analytic extension f* on
an ellipse E° C C, p > 1/2.
Then

I_ n <C 2 —2n * .
|1 — Q" < C(2p) Zléla%v @

This one-dimensional error estimate can be easily transferred to the error of the
Tensor-Gauss quadrature.

Definition 5.3.14. For 1 < i < d and —>0 < a; < b < oo let w :=
®le1 [ai,bi] € R¥. A continuous function f : @ — C is called component-

wise analytic if there exists a (,0,-),-“’:1 € R4 with p; > (b —a;) /2,1 <i <d such
that forall 1 <i < d and all x € w the function

fixilai,bi] > C, fix (@)= f (X1, .., Xic1, 8, Xig1s .- Xq)
can be extended to an analytic function f; x : ng » — C.
1-°Y1

Theorem 5.3.15. Ler f : [0, l]d — C be componentwise analytic and let (,(),-)fl=1
be as in Definition 5.3.14. Then the error for the Gaussian quadrature with n; nodes
per coordinate direction, 1 < i < d, satisfies the estimate

B f| < anwﬂmq<zcam”'mxmwmam

i—1 X€lo, 1] i—1 x€[o, 1] z€9EPI

The constants C;, 1 <i < d, are as in Theorem 5.3.13.

Proof. Tt suffices to consider the case d = 2, as the statement for d = 1 has
already been treated in Theorem 5.3.13 and the result for d > 2 follows by means
of induction. We use a classical tensor product argument. Let g : [0,1] — C,
£ :[0,1]* — C be analytic and (,o,-)l-z=1 as in Definition 5.3.14. We set

Lig:= [, g(t)dt, ugnw=ﬁfanm
;llg = 271:1 @Wjn& (Ej,n)’ (Q;zf) (1) := Z 19y, nzf( ,Sj,n2)~

This yields the error

B = (1= Q}'0%) / = (hlr = Q5 + 1105 — 0 05*) /
=1, (E "2f)+E"‘( 22 1)
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with E' := I; — Q}". Fori = 1,2 the integral /; : C° ([0, 1]) — C is continuous,
i.e.,
[11g] = max [g (1)], |(I2f) ()] = max | f(z,5)].
t€f0,1] s€[0,1]

The weights of the Gaussian quadrature are positive and add up to the length of the
interval Z?:l wjn = 1 (see [225]). It follows that

ny
A=Q" f1 = max [E3*f (1) + 3 wjna [ET' S (+Emo)|
, =

< max |E32 f (t.-)] + max_|ET' f (-.1)].
tef0,1] 1€[0,1]

5.3.2.3 Estimates of the Analyticity Ellipses of the Regularized Integrands

In this subsection we will estimate the size of the analyticity domains of the regu-
larized integrands from Sect. 5.2.4 as well as those that have been extended on these
domains. We again distinguish between four cases: identical panels, panels with a
common edge, with a common point and with a positive distance to each other. The
estimates of the integrands on the analyticity ellipses are always derived accord-
ing to the same concept: First the integrals are transformed onto the unit triangle
or square. By means of suitable expansions in local coordinates the singularity is
determined in the transformed, complex coordinates. More specifically, the size of
the ellipses on which the integrands can be extended analytically is estimated. Then
other properties of the integrands on the ellipses are estimated, such as the Gram
determinant, basis functions and kernel functions. We also explicitly determine the
dependency on the panel diameter 4, ; so that the constants in the estimates gen-
erally depend only on the polynomial degree p of the boundary element space and
the shape-regularity of the mesh.

Case 1: Identical Panels

We first consider the case 7 = 7 = S and use the representation /. / from Sect. 5.2.4.
In view of the definition of k3 [see (5.36)] we analyze the analyticity domains of the
basis functions, the surface elements and the kernel functions separately. We begin
with the kernel function in local coordinates. We again assume that the panel 7 can
be written as the composition of a global chart y and an affine mapping ™" :
R? — R2%: y, = yo yine et the affine part again be of the type yfin (%) =
A; + m.X.

For the parametrizations under consideration the difference variable z = y — x
has the following representation in two-dimensional polar coordinates [see (5.22)]
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2= fr@+R) = xR =her Y (her)" bn (127 R) . §)

m=0

=: (her)d (Y2 (R), her, by 'm.£)

T

with

-1 m+1
<hr mfi:’ V) X) (W)

m (W, €) = ( (m + 1)!

and a function d that depends only on the global chart y but not on the triangulation
X In the same way as in (5.20c) we deduce the representation

k(x,y,z) = (hrr)_s d3.s (Xifﬁne (X), her, hzlsz) (5.52)

with a function d3 ; that depends only on the global chart y and the kernel func-
tion k. L

The basis functions b;, b; on the reference element are polynomials of degree p
and have the representation in polar coordinates

Bij k1, £) = b X) by X+ rE),

which is independent of the triangulation G. With this we have for the integrand
ko (X, X + r§) from (5.25) the representation [see (5.50)]

rky (X, X 4 r§) = r (detmy)? Bij (X,r, &) gXx (W) gX (V) (her) ™ x
ds,s (W, her h7'meg) | (5.53)

where W := i (%) and v := y2fire (% + r£). The functions B;,;, g%, d3,» depend
only on the global chart y, the polynomial degree p and the coefficients of the kernel
function k and, in particular, they are independent of the triangulation. They can be
extended to suitable complex neighborhoods of the parameter domains, the size of
which also does not depend on the triangulation.

The numerical quadrature was not formulated in polar coordinates but with
respect to the (&, n)-coordinates, which are mapped to (X, r, ¢)-coordinates by
means of the transformation from (5.35). The transformation with the index i in
(5.35) corresponds to the summand 7 in (5.34) and it is denoted by T;:

(5\(7 r, (p) = (3:1' (57 77) (554)

As these transformations are again analytic and independent of the triangulation, we
obtain the analyticity with respect to the coordinates (£, ) € [0, 1]*.

We use the following notation to describe these neighborhoods. For p > 0 and
i €{1,2,3,4} weset
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— .
ED = (0,1)x (0. 1) x ... x (0, 1) x £ x (0. 1) x (0, 1) x ... x (0, 1).

(i—1) times (4—1) times

Lemma 5.3.16. Let the kernel function k satisfy Assumption 5.1.19 with s € Z <.
Let 0 := min {1, s}. There exist constants p; > 0 and pp > 1/2 that depend only
on 0, from (5.49), the global chart , the coefficients of the kernel function and the
polynomial degree p such that the integrand from Sect. 5.2.4 (1.1)

3
kot (0.1)* > C k4(s,n)=s3n%nzzk3(&,ﬂr("f’s"’)) (5.55)
sin ¢

i=1

can be analytically extended to ?;11)/}’1 U Uj:z ?%) after substituting as in (5.54).
We have the estimates

sup  |ka (&, )| < Chi?P,

=)
¢Emec 01/ht

sup[ka (&,1)] < g7
(Eme€ )

for2 <i <4,

Proof. We only need to analyze each summand in (5.55) separately and in the
following we will abbreviate T; to T.

We will first consider weakly singular kernel functions with s < 1. The size of
the analyticity ellipses can be determined from the representation (5.53) and from

Bz — A||
he

C.—B _
1€ =Bell _ vz pg

57 meg ]| < 18] "

+ 162

[with ¢; from (5.48)]. In order to estimate the integrands on the analyticity ellipses
we consider the functions in (5.53) separately. To estimate the functions B; ; in
(&, n)-coordinates, we consider the transformations that appear in Sect.5.2.4, I.1,
and obtain

Bij o (&) = bi (EA1 (1) b; (EA2 ()

with functions A1, A, that are affine with respect to every variable. Since bA,- and b I
are polynomials of degree p, we deduce that

sup  |BijoT (E.n)|< Ch7?” and  sup |Bi,joT (E.n)|=<C.2<i <4,
Emeg,,. Eme€ )
(5.56)
with a constant C that depends only on the polynomial degree p.
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We now consider the roots of the Gram determinants g, (X), g (¥) and define for
i=1,2
Uppi = {Ac +Eme Ay () s € e €0, 1
Depending on 6; and the global chart y we can choose p; > 0 sufficiently small so

that we have
Uﬂl,i cur,

where U* C C x C is the domain onto which y can be extended analytically. From
this we have fori = 1,2

sup  |gX o x¥™ (EA; ()| = sup [g¥ (W) = C,

&, ”)Egjnll)/hr weU* (1)

where C depends only on the global chart y. In the same way we can show that

sup glox¥™e N ()| <C. i=12 j=2034
Emesy)

We consider the singular term (h.r) ™" in (5.53) together with the factors £>n3n>.
In (&, n)-coordinates we have

Enina Enim &y

(her (hr%"hnz VA4 (773)>S A ()

with a polynomial A4 which satisfies A4 (n3) > 0 for all n3 € [0, 1]. It follows that

Enin)'™*

2
sup EST Emna)' ™ < Ch?,
Eme? D, AL (03)
2
1 — —
sup — T (enim)' < On?

. 2
Ene€D) Ay (ns)

for i = 2,3, 4. Finally, we need to estimate the factor ds ¢ (W,hrr,hr_lmr&‘) in
(&, n)-coordinates. We obtain the estimate

<C
&, r,0)=T(,n)

)

sup s (22 G e e ()
Emes 5311)//41

sup
Eme€ D)

dss (61 R) her 7 me (528))

&ro)=TEn|
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fori = 2,3, 4 with the same arguments as for g,. With (det mr)2 < Ch‘r1 we have
proved that

sup  |ka (E,)| < Chi™2P and  sup |ka (£,m)| < ChY™S, i =2,3,4.
Emeg), . Eme€ )

We now consider Cauchy-singular kernel functions that satisfy Assumption
5.1.19 with s = 2. The integrand from Sect. 5.2.4, 1.1, is a sum of pairs of kernel
functions of the type k» (X, X — Z) + k» (X — z,X). We can therefore apply Theo-
rem 5.1.22(c) and show that the above-mentioned arguments can be applied to the
terms ko (X,X — Z) + kp (X — Z,X). Thus we can also prove the statement for the
kernel function from Assumption 5.1.19. O

Proposition 5.3.17. The statements from Lemma 5.3.16 can be directly transferred
to identical squares, as the variable transformations given in Sect. 5.2.4, 1.2, are of
the same type as for triangles.

Case 2: Panels with a Common Edge

We apply the same ansatz that we developed for identical panels to panels with
exactly one common edge. We first consider the case of two triangles t,f € G
with y; (§£,0) = x; (£,0) for all £ € (0,1) and use the representation /I./ from
Sect. 5.2.4. We again assume that the local charts y,; and y; can be written as a
composition of global charts y1, x> and affine transformations

afﬁne afﬁne

Xv = X1° X< Xt = X209 X;

For the parametrization in three-dimensional polar coordinates Z = ré&, r =
Iz||, &€ = z/ ||z|| [see (5.21)] under consideration, the three-dimensional difference
variable Z = (J1 — X1, J2, X2)T has the representation

z= Xt(21 ;;21) _ Xr()ge;) = hr Z (her)™ L, ( afﬁne(x1) X?:fﬁne(xl),$>
S .

with

" @) = (' (Co — B V)™ 0 ()

(m 4+ 1)!

(hitme @), v)

In (V, W, §) =

and a function b that depends only on the global charts yi, y» but not on the
triangulation. In the same way as in (5.20b) we deduce the representation

k(x,y.z) = (hir)” b3s( affine (£1) *yaftine (X1) or, by mt( 1), by s (Ce —B,))
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with a function b3 that depends only on the global charts yi and the kernel
function k.

The numerical integration is not carried out in (X1, r, §)-coordinates but in sim-
plex coordinates (£, n). The associated transformation is denoted by T;, (X1,7,§) =
T (§,1), where the index j refers to the single summands in the representation
from Sect. 5.2.4(11. 1-11.4). It will be omitted in the following. The transformations
are analytic with respect to every variable. It is easy to verify that the 3. — 5.
components of T are independent of &, which is why we introduce the abbreviation

& =Tita(n) 1 <i<3.

The size of the analyticity ellipses of the local integrands is estimated in the
following lemma.

Lemma 5.3.18. Let the kernel function satisfy Assumption 5.1.19 with s € Z<».
Let the function ks : (0,1)* — C denote one of the integrands from Sect. 5.2.4,
II.1-11.4. Then there exist constants p; > 0 and p; > 1/2 that depend only on
0, 0:, Ck, c1 from (5.49), (5.47), (5.48), the global charts y1p, the coefficients of
the kernel function and the polynomial degree p so that ks can be analytically

=W 4 20 ;
extendedto & °) U5, € oy - The estimates

sup ks (6.m)| = Chy 7.
EMEE L),
sup ks (€, 1) < Chi™

b
EmeE )

hold fori = 2,3, 4.

Proof. The components of the integrand are each analyzed separately and we begin
with the kernel function in local coordinates.

The analysis of the surface elements and basis functions is done in the same way
as in the case for the identical panels and leads to

g (%) g (§) = |detm| [detmy| (g1 © x2™™) R) (g2 © x™™) ()

with the surface elements g; » for the global charts y1 5.
The coordinate transformations in the case of a common edge (see Sect.5.2.4)
can be written as

x=AiEn, F=AEm).  r=En5VAs () (5.57)

with functions A;, i = 1,2 that are affine with respect to every variable and a
quadratic polynomial A3 with A3 (1) > 0 for all 5 € [0, 1]*. The power £ in (5.57)
is equal to one for the transformations in Sect. 5.2.4, I1.1 and zero for the transfor-
mations /1.2-11.4. Note that the mappings A;, 1 < i < 3, are independent of the
triangulation and the surface parametrization.
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The determinant of the Jacobian of the transformation (§,7) — (X,§) from
Sect. 5.2.4 is of the form

det(D(é)) En) =En8pEn. (5.58)

with a polynomial p of maximal degree 1 with respect to & and maximal degree 2
with respect to the n-variables. For the power £’ we have
0= 2 for the transformation /1.1
| O for the transformations /I.2-4

Using this, we can deduce a representation for the integrand k3 (X, ¥) in (5.36).
Thus, with W := i (%), ¥ := i (§) and the substitutions (5.57), we obtain

ks (%.9) = |detm,||detm,| g1 (W) g2 () b; (%) b; (3)

s )™ s (). 5 (), e (200, B ()

x (Cr — B,)) . (5.59)
The product of r—* with the determinant of the Jacobian is, since s € Z <,

(her) ™ E208 p (E.) = h 582~ (5.1) (5.60)

a polynomial and therefore analytic. More specifically, p is a polynomial with
maximal degree 1 with respect to £ and maximal degree 4 — s with respect to
the n-variables. The size of the analyticity ellipses can be determined from the
representation above, while using |C; — B¢ || /h; < CI_ICK [see (5.47), (5.48)].

In order to estimate the integrands on the analyticity ellipses we consider the
functions in (5.59), (5.60) separately. Since 1;,- and b ; are polynomials of degree p

we deduce that

sup

=)
EmeE )l n,

bi (A1 &) by (A2 €)= Ch "

(5.61)
sup
(Eme€ Y

b (A1 &) by (2G| =€ 2=E<4,

with a constant C that depends only on the polynomial degree p.
We now turn our attention to the surface elements g1, g» (for the global charts
X1, x2) and define

Upre o= {Ac +mehs ) e € €0, L

Upi = {A +m; A : b
p1,t = t t 2(%_’7])(%:’7])6 o1/ he | ”
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At the same time note that i, ~ h; [see (5.47)]. Depending on 6; and the global
chart y; we can choose a sufficiently small p; > 0 such that

Up,,« CUT, Up,t C U5,

where Ul-* C C x C,i = 1,2, denotes the domain on which y; can be analytically
extended. From this we have

sup  [groxi™ (AL Em)| = sup [g1 (W) = C.

(E,n)egi}l’/hr weU*(r)

where C depends only on the global chart y;. Analogously, we deduce that

sup [g1o ™ (AL E)| =C. =234,
Ene€y)

and the corresponding estimates for g,.
We consider the singular term (h.7)”* in (5.59) in combination with the deter-
minant of the Jacobian (5.58), (5.60) and obtain

sup  (her) £ p (6.m) < Oy
Emeg N,
sup  (her)” 52771 p(.n) < Ch”, i =2,3,4.

Ene€)

Finally, we need to estimate the factor b3 5 (-) from (5.59) in (£, n)-coordinates. With
the same arguments as for g, we obtain the estimates

bzs ( dfﬁnC(X[)’ deﬁne(Xl) hyr, h mt (z;gz;),hfl%z (77) (Cr - Bz))’ <C

sup
(eme € L?/h;

sup
(2 77)6_)(1)

b (o™ (). () m (2 0) 7 T € -0 )| <

With |detm,| |detm;| < Chf we have proved that

sup ks (£, < Chy P and sup ks (5.m)| < Ch{”*
Emee), EmeeD)
fori =2,3,4. O

Case 3: Panels with a Common Vertex

We first consider the case of two triangles 7,7 € G with y; (0,0) = y; (0,0) and use
the representation from Sect. 5.2.4, I1I. We assume that the local charts y, and y;
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can be written as a composition of global charts y1, y» with affine transformations

affine affine
Xt = X199 X Xt = X209 X -

For the parametrization under consideration the four-dimensional difference
variable Z = (J1, J2,X1,%2)7 has the representation in four-dimensional polar
coordinatesz = r&, r = ||z||, § = z/ ||Z| [see (5.18)]

oo

Z= )t (2) — Xt (Z) = hyr Z (her)™ Ly (X?fﬁne( ). Xz;fﬁne(O)’ f)

m=0

= (her) b (0 (), 72 Q). her i e (E2). by 'me (52))

with

m+1 m+1

1o @ = (I me (). V) (W)
(m 4+ 1)!

(hitme §1). V)

In (V, W, §) :=

and a function b that depends only on the global charts yi, y2 but not on the
triangulation. Similarly to (5.20a) we deduce the representation

k(x,y.2) = (i)™ ass (1 Q). 2™ Q). her e (). By me () )
(5.62)
with a function a3 that depends only on the global charts yi, and the kernel
function k.

The transformation from simplex coordinates to polar coordinates is again
denoted by T, i.e., (r,&) = T (£, 1), and it is analytic with respect to every vari-
able. It is easily verified that the 2. — 5. components depend on T, not on &, and we
therefore introduce the abbreviation

& =Tit1(n) 1<i<4

The size of the analyticity ellipses of the local integrand is estimated in the following
lemma.

Lemma 5.3.19. Let the kernel function satisfy Assumption 5.1.19 with s € Z<».
Let the function ke : (0, 1)4 — C denote one of the integrands from Sect. 5.2.4,
I.1-111.4. Then there exist constants p1 > 0 and py > 1/2 that depend only
on O, 6;,Ck, c1 from (5.49), (5.47), (5.48), the global charts 1, the coefficients
of the kernel function and the polynomial degree p so that k¢ can be analytically

extended to ?;1)/ n, Y U?:z ?gz) . The estimates
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sup ke (6.m) < Chy 7.

=)
Enec 01/ hy

sup ke (§.1)| < Ch{™
Ene€D)

(5.63)

holdfor2 <i < 4.

Proof. The proof of this lemma can be accomplished with the same arguments and
analogous estimates as for the case of the common edge. O

Case 4: Panels with a Positive Distance

We will now turn our attention to the case of two panels 7,7 € G at a positive
distance apart. Let

dey =dist(r,t) ;= inf |x—y| > 0. (5.64)
(x,y)erxt

In local coordinates the integrand is again denoted by

ks (%,9) = g R & D) b ®)b; )k (e R, 20 §) 2 0 §) = Az R) (569

and is analytic with respect to every coordinate. We again assume that the paramet-
rizations y;, y; can be represented by means of global charts y;, y» that do not
depend on the surface mesh and by affine mappings yiffine, yaffine

_ affine _ affine
X‘L'_XIOX-[ 5 Xt XZOXt .

Lemma 5.3.20. Let the kernel function satisfy Assumption 5.1.19. Let (5.64) and
t=7T= @ hold for t,t € G.

Then there exists a positive constant p > 1/2 that depends only on 0, 6; from
(5.49), the global charts x1,, the coefficients of the kernel function and the poly-

nomial degree p so that k3 can be analytically extended to (Ul-z_l ?g()r t))

( ?(1)

i, T)) with p (t,t) = pmax{dy,/ h¢, 1}. We have the estimates

R des\?
sup. lks R.9)| < ChZh} ( hr’t) d; i=12,
&,y)€e 8 (r 0 T

N (5.66)
sup lks (], 9)| < ChZh? ( hrtt) d;} j =34

2 ye £ U)
&y)e & 5(t,7)

Proof. We first consider the statement for the variable X7.

The scaling of the affine mapping xf" combined with the distance condition

(5.64) yield the existence of a constant p > 0 such that
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N ~ ~A A —
Upe = {Ac + 31 (B = A + 52 (Co—Bo) s G e €0, |
is contained in Uy". Here U C C x C denotes the domain to which y; can be
extended analytically. We have a corresponding result for the remaining variables.
As before, fori = 1,2 and j = 3, 4, we deduce the estimates

d P
sup ks (X, )| < Ch2h? (—’) d;},

ove #) hr
(X,y)ESp/hT

A des\?
sup lks (X, 9)| < Chfht2 (—) d.;.

2 e 2 ) ht
(X,y)ESp/hT
O

Proposition 5.3.21. If either T or [ is the unit triangle we precede yffin® or yaffine
by the mapping ((1,¢2) — (§1,¢182) (with Jacobian determinant y), which maps
the unit square to the unit triangle. The above-mentioned analysis can be repeated
for the composite mapping and one obtains results that are analogous to those in

Lemma 5.3.20.

Remark 5.3.22. The constants in the quadrature error estimates from this section
depend on the shape-regularity of the triangles and the polynomial order. In [203]
and [202] numerical quadrature for degenerate (non-shape-regular) panels is intro-
duced and analyzed, which are used for the adaptive hp-version of the boundary
element method (see [222]).

5.3.2.4 Quadrature Orders for Regularized Kernel Functions

The estimate for the analyticity domains for the regularized integrands allows the
use of derivative free error estimates from Sect. 5.3.2.2.

The Singular Case

Let k, : (0,1)* — C denote one of the integrands from Sect. 5.2.4./-11I. The num-
ber of nodes with respect to the £-integration is denoted by n; and with respect to
the n;-integrations, 1 < i < 3, by np. We set n = (ny,n3,n3,n2), and p again
denotes the polynomial degree of the boundary element space.

Theorem 5.3.23. The approximations of the integrals 1-1I1 by means of Tensor-
Gauss quadrature converge exponentially with respect to the number of nodes:

|E"k, | < Ch172P (p1he)*" + Ch4=S (2p0) 72"

with py > 0 and py > 1/2.
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Proof. Note that for two triangles t,¢ € G with T N7 # @ we have ch, < h; <
Ch [see (5.47)]. By combining Lemma 5.3.16, Proposition 5.3.17, Lemma 5.3.18,
Lemma 5.3.19 and Theorem 5.3.15 we obtain the assertion. O

The Regular Case

Let 7,¢ € G with a positive distance d; [see (5.64)] and for T = 7 = @ let the
function k3 be as in (5.65). If either  or 7 is the unit triangle we first apply the
mapping (1, ¢2) — ({1, ¢1¢2) as in Proposition 5.3.21 and the resulting function is
again denoted by k3. The polynomial degree of the boundary element space is again
denoted by p.

Theorem 5.3.24. The approximation of the integral |, 0.t k3 (X,¥) dxdy by means
of Tensor-Gauss quadrature converges exponentially with respect to the number of
nodes

14 D
E"ka| < C (hehe) d ((”Z—) (2 (r.1)) " + (i) (25<z,r))—2"4)

with p (t,t) = pmax{d¢/he, 1} and p > 1/2.

Proof. The statement follows from Lemma 5.3.20, Proposition 5.3.21 and Theo-
rem 5.3.15. |

5.3.3 The Influence of Quadrature on the Discretization Error

In Chap.4 we introduced the Galerkin boundary element method for the abstract
variational problem: Find # € H such that

a(,v)=F (v) Vve H (5.67)

with

a(u,v) = [FM(x)u(x)v(x)dsx+[Fp.v.[Fk(x,y,y—x)u(y)v(x)dsxdsy.

(5.68)
The boundary element space is given by the abstract notation S C H and the local
nodal basis is denoted by (b,-)f-vzl. With this we can define the linear system of
equations
Au=F

with
A,-,j:a(bj,b,-) 1<i,j <N and Fl‘:F(bi) 1<i<N.

The coefficient vector u is associated with the Galerkin solution by ug= " IN=1 u; b;.
The approximation of the matrix entries and also the right-hand side by means of
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numerical quadrature leads to a “perturbed” linear system of equations

Au = F,
which in turn can be written as a variational problem: Find g € S such that
a(is,vy=F®), Vves.

The error u — g was abstractly analyzed in Sect. 4.2.4. In this subsection we will
apply these results to the perturbation by numerical quadrature and derive a relation
between the convergence rate of the Galerkin discretization and the local quadrature
order.

First we will need some notation. The quadrature method for the approximation
of the integrals

15 = / pv. / k (X,y,y —X) bi (X) bj (y) dsydsy (5.69)
T t

is denoted by Qi’i‘t. The associated error is given by

i . giJ i,j
Erxt i Irxt - Xrxte
We use the convention that for boundary element functions u, v the coefficient vector
is always denoted by u, v € C¥ in the basis representation.
For boundary element functions u, v € S we set

N
It (wv) ==Y wiv,; I3 (5.70)
i,j=1

and, similarly, define Q;x; (,v), Erx: (u,v). Note that the sum in (5.70) can be
reduced to a sum over i, j with |[suppb; Nz| > 0 A |suppbj N t| > 0. This
motivates the definition of the index set Z; by

T, :={i : |supph; N 7| > 0}. (5.71)
Finally, we set
Bodi= max B (5.72)

Assumption 5.3.25(a), (b) is satisfied for all boundary element spaces from
Chap. 4.

Assumption 5.3.25. (a) There exists a constant P > 0 such that

max{{Z, 1t € G} < P.
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(b) There exist constants Ay, Amax that depend only on the polynomial degree p
such that the spectrum o (M) of the matrix

= (/13,- (%) b, (i)df()
T i,j€T;

satisfies the estimate

0 < Amin <A < Apax < 00 VA €0 (m).

As (5,) . is a basis in P, and (-, ) 2(;) defines an inner product on P, m is
1€Lz

positive definite and the existence of the constants Ay, Amax 18 guaranteed. How-
ever, note that these can go to either zero or infinity as the polynomial degree p
increases.

Example 5.3.26. Let T be the unit triangle. For:

e p=0wehavem = (%) and Ayin = Amax = 1/2.
e p =1wehave

(/Olfjléi(i)bj(ﬁ)dﬁ

and Amin = 1/24, Anax = 1/6.

m

N—
-~ w
~.
Il
I
Il
-]l

)]l
Sl

Let T be the unit square. For:

e p=0wehavem = (1) and Apin = Amax = 1.
e p=1wehave

11 1 1
9 18 36 18

LI 4 11 1
m:([ / bi(X)bj(X)dX) = Eﬁlig’f
0 0 i,j=1 36 18 9 18
1111

18 36 18 9

and Amin = 1/36, Apax = 1/4.

Lemma 5.3.27. Let Assumptions 5.3.5 and 5.3.25 be satisfied. Then

| Exvxe (. v)| < Chz eV ESG | ull L2y V1] 20y

Xt

forallu,v € S, where C depends only on Amin, Amax, 90 (7), 6o (¢) [see (5.5)] and
P from Assumption 5.3.25.
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Proof. We use the Cauchy—Schwarz inequality and obtain

Eoa @)l = | Y wi¥ Egy| < [EZF1 Y lwil ) |v)|
(i,J)ELe Xy i€Zy JETL;
2
<IEZSIP [ lwil® [ vl
i€y JE€Is
Furthermore, with & = u|, o x; and g := maxse; |gr (X)| we have the
representation

/ uf? dx = [ (g: ®) [d QP d& < g™ [ 2 ®) di.

Withu; = (u;); and the matrix m from Assumption 5.3.25 we obtain

i€Tlr p

A 2
[|u| dx < gM™almu,; < g™ Amax Z lu; .
i€T;
In a similar way, we can show that
[ ul> dx = gl Amin Y Ju;|*.
i€T,

From this we have for the error E;x; the estimate

P
|Eoxe (u,v)| < |EXG | ———lull2(x) IVl L2(s) -

Xt ——
min
V 87" 81 Amin

Assumption 5.3.5 combined with Proposition 5.3.8 implies, as in (5.50) and in the
proof of Lemma 5.3.16, the estimate

chZ < gmm < Ch2

from which we have the assertion. O

The following corollary is a by-product of the previous proof.
Corollary 5.3.28. Under the conditions set out in Lemma 5.3.27 we have
¢ lull oy < hllul < C lull oy Vues.
where u denotes the coefficient vector of the boundary element function u in basis

representation and ||-|| is the Euclidean vector norm in RN . The constants c, C
depend only on Ayin, Amax, B0 (7), 8o (t) [see (5.5)] and P from Assumption 5.3.25.
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We will now deduce the total error from the local error estimates. We consider
the variational problem: Find # € S such that

[Al(x)u(x)v(x)dsx +[V(X) (p.v./ k(x,y,y—x)u(y)dsy) dsy
r r r
=[r(x)v(x) dsx (5.73)
r

forallv e S.
The integrals

/imm/%wxxy—mbmwd%mx
T T

are regularized (see Sect.5.2.4) and then approximated by means of the Tensor-
Gauss quadrature method. The integrals

AM@M@%@MX

are approximated by stable quadrature methods with an exactness degree m; and
the integrals

/ bi (x) r (x) dsx
r

by stable quadrature methods with an exactness degree m5.

Let A be the Galerkin matrix determined by numerical quadrature and a (u, v) :=
(Au V) the associated, perturbed sesquilinear form. Let F be the right-hand side
determined by numerical quadrature. We set

. 1 1 rma
Eoax = meeuéh hy " ETE.

Theorem 5.3.29. Let Assumptions 5.3.5, 5.3.25 and the conditions from Corol-
lary 5.3.12 be satisfied. Let the sesquilinear form a : H" (1") x H*(T) —» C
in (5.68) be continuous, injective and coercive for some | € { 5.0, 2} and let p

denote the polynomial degree of the boundary element space S.
Then

la (u,v) — a (u,v)| < CR™ 20722 | e oy IVl ey

+Emax (#9) llull L2y VIl L2

for all u,v € S. The constant C does not depend on h but, in general, it does
depend on Apmin, Amax, 00 (T), 0o (2) [see (5.5)], P from Assumption 5.3.25 and the
quasi-uniformity of the mesh (see Definition 4.1.13).
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Proof. Let E; be as in (5.44) and E.x; as in (5.70). We define [u] as the smallest
integer that satisfies [1] > . We observe that every introduced boundary element
space satisfies S ¢ H ™1 (I).

The quadrature error in the sesquilinear form in (5.73) can be estimated by the
inverse inequality (see Theorem 4.4.2) according to

la . v) =@ @) <Y |Ec )|+ Y |Eext (.v)]

T€G T,t€g
<CY W Nullgoy Wlaee + Y hy hi "ER lull 2y IVl 22
Teg T,t€G
1+2 -2
< CH™ IR0 N ) gy IV ey + Emax 22y DIVl z2q
T€g €@ teg

< CH™ 222 || ey IV ra @y + Emax (B9) 1l 20y VIl L2

= ChmF1+2n=2p ””‘HHM(F) ||V||Hu(r) + Emax (19) ||M||L2(r) ||V||L2(r) .

O

With respect to Theorems 4.2.11 and 4.2.18 we can now determine the necessary
quadrature orders. For a prescribed consistency tolerance |a (¢, v) —a (u,v)| < &
the local quadrature order can be determined by Theorem 5.3.29 and, by means of
Theorems 5.3.23 and 5.3.24, the number of Gaussian points per coordinate direction
can be determined.

We will carry out this process for characteristic examples. It is our goal to choose
the number of quadrature points in such a way that the order of convergence of the
original Galerkin method is maintained for the Galerkin method that is perturbed
by the quadrature. For this we assume that the Galerkin method converges with an
optimal order of convergence, i.e., the exact solution is sufficiently regular. In this
discussion we will restrict ourselves to shape-regular, quasi-uniform meshes (see
Definitions 4.1.12 and 4.1.13). For the general case we refer to [105, 106].

We assume that the sesquilinear form a : H* (I') x H* (I') — C in (5.68)
is continuous, injective and coercive with a u € {—%, 0, %} The local polynomial
degree of the boundary element spaces is denoted by p € Nj. If the surface is
sufficiently smooth and the solution of Problem (5.67) is sufficiently regular the
error estimate for the Galerkin error (see Sect. 4.3)

llu = s | gy < CRP 7 ull o oy (5.74)
holds. In order to also obtain this order of convergence for the perturbed problem,

we choose the tolerance § in Theorem 4.2.11 as § = ChP 17 From the estimate
in Theorem 5.3.29 and with the inverse estimate we obtain for all u,v € S

la u,v) = )] = € (=27 F2 8l 0+ B (BOR Nl 209 ) IV sy

@ u.v) = @ )| = € (K202 4 By (89) W)l gy W ey
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with [t := min {u, 0}. If the local quadrature error and the local degree of exactness
m satisfy the estimates

EN | < ChPt5Hl Wt e G, Y(i,j)eZ(r)xI(1),
B < (DET@XTO. o
my > 3(p—
we deduce with G < Ch™? that
~ +1—
la (u,v) —a (u,v)| < ChP" " H Jlul gmastse.0s () 1V gy - (5.76)

la (u,v) —a (u,v)| < C (RPHH 4+ AP0 ) oy V]| e ry -

Sincep+1—p>0andp+1—pu+p>min{l,1—p}> 1/2 the terms hP 171
and h?T1=1#F1 converge to zero for i — 0, and therefore the Galerkin method with
quadrature is stable and consistent for 1 < hy.

Theorem 5.3.30. Let the mesh G be quasi-uniform with h < ho < 1 and let
the assumptions from Theorem 5.3.29 hold. The order of singularity of the ker-
nel function is denoted by s as in Assumption 5.1.19. Let the quadrature orders
be chosen as

- 3p+4—pn—p

(p+1+s5s—pu—f)lloghl
ng = 5 , >

"= 2log (2p)

5.77)

in the singular case and as

1o h—2p—1+u+ﬂd17—s
ny=ng > e e (5.78)
21log (2p),r)

with y.; 1= max {dist (z, ) / h, 1} in the regular case. We assume that the exactness
degrees for the approximation of the integrals in (5.1) satisfy

my>3(p—u) and my>2(p—pu). (5.79)
Then the Galerkin method with quadrature is stable [see (4.152)].
If the exact solution u is contained in H' (T') for at € [max{0,u},p + 1]

and the right-hand side in (5.73) satisfies r € C™2+1(T") the solution iis of the
perturbed problem satisfies the error estimate

llu = its | gueery < CH ™" \lull gery -

Before we prove this theorem we will make a remark concerning its conse-
quences.
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Remark 5.3.31. The estimates (5.77), (5.78) show that the quadrature orders n,, ns,
ng should grow logarithmically with h — 0 for singular integrals and for the
nearly-singular integrals with dist (t,t) ~ O (h). In the far field, i.e., for yrs ~ h™!
and dr; ~ 1, the quadrature orders are independent of the step size h.

Theorem 5.3.30 is explicit with respect to the step size h. The quantities p and p;
usually depend on the polynomial degree p, which is, however, always fixed for the
discretizations under consideration.

Proof of Theorem 5.3.30. Let k4 : (0,1)* — C denote one of the integrands from
Sect. 5.2.4.I-111. If we insert (5.77) in the estimates from Theorem 5.3.23 we obtain

|Enk* | < Clhz-i-P—M—ﬂ

with a constant C; that depends only on the constants C, p; from Theorem 5.3.23
as well as p, u, fi.

If we combine the estimate (5.78) with the estimate from Theorem 5.3.24, by
virtueof h < 1 and 1 < y,; = max{d;/h, 1} we obtain

|E k3| < CohPH5—HIt,

with a constant C; that depends on the same parameters as Cj.

Since the choice of m; in (5.79) is the same as in (5.75), we have the estimates
(5.76) and, thus, the stability and consistency of the sesquilinear form.

The consistency estimate for the approximation of the right-hand side
Jpv(®)r (x)dx still needs to be shown. We then have with E?* from (5.44),
Corollary 5.3.12 and the inverse inequality

[FM=F®|=Y_IEM v <CY W22 vl goe) Il em+i
T€g T€g
< CH™ 2P OV vl ey 17l emat1

< CRP P Wl ey 7l gmatr y -

We deduce from Theorem 4.2.11 with 4+ := max {u, 0} that

= sl ey = € { min (Il = well maary + 74 el o ry)
wy Y4

+ PP oy } (5.80)

Let wg be the best approximation of the solution u with respect to the H*+ (T")-
norm. It satisfies ||w¢ || gu+ty < [lull gr+ () and it follows from Theorem 4.2.17
that lu — w|| gru(ry < Ch'™" ||u|l e (1. The conditionu € H' forat € [y, p+1]
guarantees the existence of [[u| gu+ (r).- O

The error estimates that we have developed thus far can not be directly applied to
hypersingular kernel functions that have been regularized by means of integration
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by parts (see Theorem 3.3.22). The sesquilinear form contains an additive term of
the form

fr G x=) (Du), Dy () disdsy,

where D denotes a tangential derivative of first order which satisfies

IDull L2y = C llull g1 -

These integrals can be regularized with the transformations that were developed
in Sect.5.2 and can then be approximated by Tensor-Gauss quadrature methods.
However, the error estimates have to be slightly modified. We will summarize these
modifications:

(a) The size of the analyticity ellipses remains qualitatively unchanged in the sin-
gular case. In order to estimate the integrand in relative coordinates, the basis
functions B; ; := (Dbi , Db j) have to be estimated on the analyticity ellipses. In
general, the operator D also contains derivatives of order zero so that the poly-
nomial degree of the basis functions is not necessarily reduced by one order after
applying D. Therefore the estimates (5.56), (5.61), (5.63) and (5.66) remain
valid unchanged. Note that for the order of singularity of the kernel functions
we have s = 1 in the representation through integration by parts.

(b) It follows from the arguments above that the error estimates from
Theorem 5.3.23 and Theorem 5.3.24 (with s = 1) remain valid.

(c) The hypersingular integral equation in Theorem 3.3.22 is an equation of first
kind so that we have A1 = 0 in (5.68).

(d) For the error analysis we set

I = / k(% y.y — x) (Db (%). Db; (v)) dswdsy.
Xt

and we denote the associated quadrature method by Q;it and the quadrature

i,J

error by Eéxjt The error Epn,y is now defined by the new quantities / ri,th’ oxt

as in (5.72). Under the same conditions as in Theorem 5.3.29 we have

|a (u,v) —a @, v)| < Emax (89) llull L2y VIl L2(r)

< Emax (£9) ”u”Hl/z(I‘) ||v||H1/2(l") :

(e) The formulas for the quadrature orders in Theorem 5.3.30 are applied with s = 1
and the results are carried over as is appropriate.
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5.3.4 Overview of the Quadrature Orders for the Galerkin
Method with Quadrature

5.3.4.1 Integral Equations of Negative Order

We first consider the boundary integral operator V : H —1/2(r) - H'Y2(I) for
the single layer potential. The following table summarizes the number of quadrature
nodes and the degree of exactness for various polynomial degrees. Note that there
is no integral of the form (5.1). The quadrature order for regular integrals depends
onh and yo; = max{dy;/h.1},i.e., n3 = ng = Ny (h, y7,t). The case n, (h, 1)
corresponds to the almost singular case, i.e., dist (z, #) ~ h and the case 1, (h, h™")
corresponds to far field integrals, i.e., dist (z,7) = O (1).

ni na Nyeg (h» Xr,t) Nyeg (h, 1) Nyeg (h» h_l) ny
|log (h=2d})|
=0 3 [3C; [logh|] | ———22 | [C,2 |logh 1 1
P [3C1 [loghl] { Yoz 2yes) [C23 [log hl]
[log (h™*)]
p=14 [4C; |logh|] | ————— | [C22|logh|] 2 3
2log (2pxz,1)

The constants Cy, C, are independent of p, h and dist (z, 7).

5.3.4.2 Equations of Order Zero

We now consider the boundary integral operator for the double layer potential or
for the adjoint double layer potential. We consider the mapping as an operator K :
L? (') — L2 (I). If we apply the formulas from Theorem 5.3.30 to an operator of
order zero, we obtain the following expressions for the number of quadrature nodes
or for the required exactness degrees. Note that in this case we encounter an integral
of the type 5.1.

ni ny Nreg (h’ Xr,t) Nreg (h’ 1) Nyeg (h’ Ch_l) mip my
llog (h'd;7)|
=0 2 [3Cs|logh|] | ———2L2 | [2C4 [logh 1 0 0
P [3Cs [logh[] 2oz 2oyer) [5Calloghl]
_|102(h_3dr_tl)|_
p=14 [4Cs|logh|] | =————— | [2C4|logh]|] 2 3 2
2log (2pxx,)
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5.3.4.3 Equations of Positive Order

We now consider the boundary integral operator W : H 12(ry - H™Y2(ID)
of order 1. The following table gives us the required number of quadrature nodes
and exactness degrees. Note that there is no term fr Aruvdx, i.e., mq need not be
considered. The minimal polynomial degree is p = 1 and here we consider the
ansatz by means of integration by parts.

ni no Nreg (N, Yzi)  Nreg (B, 1) Mg (B, Ch™Y) ms
5 (log h
p=14 [2Cs|loghl] {ﬂw [Celloghl] 2 1
4log (2pxr.t)

Remark 5.3.32. Our analysis of the quadrature in the far field can be refined by
using the higher regularity of the boundary element functions. More precisely, we
often have S C H**S (T') with an s > 0, where H" (T") denotes the energy space
[see (5.74)]. Details can be found in [200] and [140].

5.4 Additional Results and Quadrature Techniques

In the work of O. Bruno et al. (e.g. [34, 35, 161]) on frequency robust boundary
integral equation based solvers for electromagnetic and acoustic scattering, a key
component is the use of frequency dependent numerical integration to deal effi-
ciently with the highly oscillatory integrand functions (the oscillations stemming
from the Helmholtz kernel and its derivatives but also on special, oscillatory non-
polynomial shape functions which resolve the high frequency components of the
solution). This requires the use of stationary phase asymptotics for the efficient
numerical evaluation of the oscillatory surface integrals. We refer to, e.g., [36] for
details and applications. An alternative is the use of frequency adapted quadrature
methods, such as Filon’s quadrature rule which has been used by [163].



Chapter 6
Solution of Linear Systems of Equations

The Galerkin boundary element method transforms the boundary integral equation
to the linear system of equations
Ku =f, 6.1)

where K is the system matrix of the integral operator and f is the load vector. In
this chapter we study the efficient solution of (6.1). If the dimension of the linear
system of equations is very large, i.e., N = dimK ~ 10* — 10°, direct methods
such as Gauss elimination become impractical, as their complexity grows propor-
tionally to N 3. Instead, one should use iterative methods to solve the system. As
will be explained in Chap. 7, iterative methods for the solution of linear systems of
equations do not require that the matrix K be known explicitly. Their complex-
ity is dominated by the cost of a matrix-vector multiplication multiplied by the
number of iteration steps for the computation of a sufficiently accurate solution
of the linear system. The cluster method, which is discussed in Chap. 7, provides an
approximative matrix-vector multiplication with a complexity of O (N log N). This
is achieved with the help of an alternative representation of the Galerkin discretiza-
tion. As opposed to this, the evaluation of Ku with a dense matrix K in the usual
basis representation has a complexity of O (N?).

Since (6.1) already contains the discretization error, an exact solution u = K~ !f
is not necessary. It suffices to solve (6.1) approximately with a precision which is
of the same size as the discretization error. Therefore in this chapter we discuss
the most important iterative methods for the solution of (6.1): the cg method by
Hestenes and Stiefel (see [129]) for a symmetric (Hermitian in the complex case) K,
as well as certain steepest descent methods that are of the same type as the minimal
residual methods for a non-symmetric (non-Hermitian in the complex case) K. The
convergence rate of classical iterative methods is determined by the condition of the
matrix K. Equations of the second kind are usually well-conditioned, in which case
the convergence rate of iterative methods is independent of the dimension of the
matrix. The condition of the matrix K for equations of the first kind usually grows
at arate of h~! with a decreasing mesh width / (see Lemma 4.5.1). This means that
the number of iterations necessary in order to reach a prescribed stopping condition
grows as the dimension increases. If the dimension of the matrix K becomes so
large that the computing time for the iterative solver dominates the overall solution

S.A. Sauter and C. Schwab, Boundary Element Methods, Springer Series 353
in Computational Mathematics 39, DOI 10.1007/978-3-540-68093-2_6,
© Springer-Verlag Berlin Heidelberg 2011
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process, preconditioning methods should be used to improve the condition of the
transformed system. We will discuss an example of this situation in Sect. 6.5.

6.1 cg Method

First we recall the definition of positive definite matrices. Let K € {R,C}. The
Euclidean inner product on K¥ is defined by

N
(wv)=> v,
i=1
where @ — @ denotes complex conjugation. For a matrix A € K¥*V the adjoint
__\N
matrix is defined by A" := (A j,l-) . A is Hermitian if A = AM. A is positive
=1

i,j
definite if
(Au,u) >0  YueKV\{0}.

The cg (“conjugate-gradient”) method by Hestenes and Stiefel for the solution
of (6.1) with positive definite matrices K is based on the derivation of (6.1) by
minimizing a quadratic functional, i.e., computing u* € K" so that

J(u*) = min{J (n):ue KN} with J (u) := %(Ku, u) —Re (f,u). (6.2)

Foru € KV, r(u) := f — Ku denotes the residual of u.

6.1.1 cg Basic Algorithm

The cg algorithm constructs a sequence (u;); ¢y of vectors u; € K® that converges
to the exact solution of (6.1). We begin with the cg algorithm in its most basic
version.

Algorithm 6.1.1.
Initialization:
u € KV given
ro ;= f— Ku
0 0 (6.3)
So € KN

po :=so € KV
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Iterations: Fori = 0,1,2, ... evaluate

ai+1 € K,
Wiyl =W +Qi+1Pi,

rig1 (=1, —oi11 Kp;,
6.4)
sit1 € KV,

Biv1 € K,

Pi+1 = Si+1 + Bit1 pi € KV

We still need to determine «;, f;, s;. For this we note that for the derivative of J
in the direction of a vector z € KV at the point u; we have

(J'(w;),z) = Re (Ku; —f,z) = —Re (r;,z). (6.5)

Therefore u; € K" minimizes J(-) on an affine subspace Z C K¥ if and only if
Re(rj,z) =0forallz e Z.
In the following Z will be spanned by the directions of descent p; for j < i. We
define «; +1 by
(ri.pi)

— 2 if (Kp;.pi) #0. 6.6
Kp..pi) if (Kp;,pi) # (6.6)

A+l =

We have (ro, po) = (ro,so) and from (6.4) we have (r;,p;—1) = 0 fori > 1,
from which we deduce by using (6.4) that

(ri,pi) = (ri.si + Bipi—1) = (ri.si), i>1 (6.7)
With (6.6) this yields
(ri,si)
g = i8] (6.8)
T (Kppi)

We determine §; 41 in Algorithm 6.1.1. We have

Wi+1(rig2.Pi) = Xi+1(riv1 — 2 Kp; 1. pi) = dit2(pi+1. —i+1Kp;)
=i y2(Si+1 + Bit1Pi-Tit1 — i) .
We have already seen that the new residual r; 45 is perpendicular to the direction
Pi+1. It is now our aim to determine 8;4+; in such a way that r; 5 is also perpen-

dicular to p;. We will show in Proposition 6.1.3 that r; 4, is then perpendicular to
allp;,j <i+ 1
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For (r;,s;) # 0 we thus set ;42 (Si+1 + Bi+1Pi>Ti+1 —ri) = 0 and obtain
[using (6.7)]
Sit1.Ti4] — I
Bit1 = M (6.9)
(si.1;)

One possible choice of s; which ensures that (r;,s;) # 0 forr; # 0is
s;=r;,1i=0,1,2,.... (6.10)

Algorithm 6.1.1 combined with (6.8)—(6.10) defines the so-called Polak—Ribiere
version of the cg method [183].

6.1.2 Preconditioning Methods

We will see that the convergence rate of the cg method depends on the condition of
the matrix K. If it is large the computational complexity of the iterative solver may
start to dominate the entire discretization. A remedy for this is the use of precondi-
tioning, which we will consider on an abstract level in this section. For every regular
matrix C € KV*¥ the solution of the preconditioned system

CKu = Cf (6.11)

solves (6.1). By choosing C in a suitable way, we aim to decrease the condition of
the system matrix CK in (6.11) considerably compared to the condition of K. Note
that we obtain Algorithm 6.1.1 if we choose C = I. In this section we will present
the cg algorithm for the preconditioned system (6.11).
Let C : KV — K* be positive definite. As an alternative to s; = r; in (6.10) we
may choose
S = Cl’,‘. (6.12)

Then we have (r;,s;+1) = (r;, Cri+1) = (Cri,rit+1) = (si,ri+1). We have seen in
Sect. 6.1.1 that the given choices for o; 1 [see (6.8)] and B; 41 [see (6.9)] determine
the relation (p;,ri4+1) = (pi—1,Tri+1) = 0. From this and with (6.3) we have

fori =0  (s;,ri4+1) = (po,11) =0,
fori > 1 (si.riv1) = (pi — Bi Pi-1.Ti+1) = 0. (6.13)

Inserting this into (6.9) we obtain

(Si+1.Tig1)

sr) (6.14)

Biv1 =

Algorithm 6.1.1, (6.8), (6.12) and (6.14) give us the Fletcher—Reeves version of the
cg method (see [94]).
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Remark 6.1.2. [. The Hestenes—Stiefel version of the cg method uses

(ri —ri_1,s;)

Bis1 = Li> 1. (6.15)

In view of (6.13), this variant is equivalent to the Fletcher—Reeves version. How-
ever, for problems in nonlinear optimization the resulting methods, in general,
are different.

2. The directions s; in (6.12) are opposite to the gradients of J(-) in the inner prod-
uct {(-,-)¢ = (-, C-) and thus correct the previous directions of descent. More
precisely, we have

(VJ (ll,') ,Si)c = Re (Kll,' —f, CSi) = —Re (l‘,’,CSl‘) = — ||Sl' ||2 < 0.

3. The Fletcher—Reeves and Polak—Ribiére versions have their origins in the exten-
sion of the cg method to non-linear problems.

6.1.3 Orthogonality Relations

For i > 0 we define the Krylov space of order i by
K= {p(CK)so : p € Pi(K)} (6.16)
where IP; (K) denotes polynomials of degree < i with coefficients in K.

Proposition 6.1.3. As long as the cg method does not terminate because of zero
division we have

Vi>0: span{po,...,p;} = span{Sq,...,S;i}, (6.17a)
Vo<, <i: (ripj)=0 and (Kp;.,p;)=0, (6.17b)
Vi>0: span{po,....pi} =K. (6.17¢)

Proof. (a) is trivial. We will prove (b). We have (r1,po) = 0. We assume that (b)
holds for an i > 1, more precisely, we assume that (r;,p;) = 0 for j < i and
(Kp;,_;.p;) = O0for j < i — 1. As we have already seen in Sect.6.1.1, we have
(rigy1,pi) = O0and (rj+1,pi—1) = 0. For j <i — 1 we obtain
(rit1.pj) = (ri —i+1Kp;.pj)
= —a;+1(K(s;i + Bi pi-1),P;)

= —ai+1(si. Kp;)
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-1
= o1 @510 (sirjp1— 1))
— -1
= aj1(@5+1)" (ri,sj+1 —sj)
6.4)

= 1@ ri.pj+1— (14 Bj+1)p;j + Bipj-1)

(induction assumption) 0
- ’

oi4+1

and for j <i: (Kp;,p;) = (rig1—ri,pj) =0.

We prove (c) by recursion. We have sg = po and thus K° = span{sg} =
span{po}. Nowlet ' = span{po,...,p;} fori > 1 be already proven. For vectors
a € K" and subspaces V C K" we use the notationa+V = span {ea+v:aekK,
v € V} in this proof. Then with 8,11 p; € span{po,...,pi} = K' and (6.12) we
have the equality

span {po, ..., Pi+1} = span{po, ..., Pi} + Pi+1
=K'+ (si+1 + Bi+1pi)
=K + Crit1.

Since Cr; = s; € span{py,...,p;} it follows from (a) that
span{po,...,pi+1} = K' + C(r; — ;11 Kp;)
=K' + CKp;.

It then follows that span {pg,...,pi+1} = K' + CKp; € K'*!. We then obtain
the equality by considering the dimensions. O

6.1.4 Convergence Rate of the cg Method

In case there are no rounding errors, Proposition 6.1.3 implies that the cg method
terminates at the latest after N steps with the solution u* of Ku = f. A far more
important property of the cg method lies in the fact that it already offers very good
approximations of u* after only i <« N steps, as we will show in this section.

Let u, = K~!f be the solution of (6.2). Then we have

J) = = (JJu—w - lullE), (6.18)

N =

where ||lu% := (u, Ku) = (Ku, u) denotes the energy norm for K. Since J'(wi1) =
—Re(ri41,-) vanishes on K' = span{po,...,p;}, J(-) assumes its minimum over
ug + K' in u; 4. Therefore we have for all real polynomials p € P;:

lwi 41 — vl < | p(CK) s0 + 1o — sl . (6.19)
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Since s g = CK(u « —uy) it follows for all p € P;4; with p(0) = 1 that we have
the estimate

[wi+1 — ik < [[P(CK) (wo —us)|[k - (6.20)

Exercise 6.1.4. Show for positive definite matrices K, C and for an arbitrary poly-
nomial p with real coefficients that

Ilp (CK) Wik < Wl max{[p(1)|: 2 €0}  VweK",

where o denotes the spectrum of the matrix CK.
One of the consequences of (6.20) is an estimate of the error after i iterations.

Proposition 6.1.5. For all i > 0 and all real polynomials p € P; with p(0) = 1
we have

lu; —usflx < max{[p(A)]: A €0} lug — k. (6.21)
We obtain a convergence estimate from (6.21). However, we first need a prepara-
tory lemma.
Lemma 6.1.6. Let 0 < a < b. The problem
min{max{|p(1)| : X € [a,b]} : p € Pi A p(0) = 1} (6.22)
has a unique solution
T'i (b—zi;k)

p@) = W,

b—a

where Ty (x) is the CebySev polynomial of order k on (—1,1) which satisfies
|Te (x)| < 1for|x| < 1and Ty (1) = 1.

If we combine this result with (6.21) we obtain the statement concerning conver-
gence.

Theorem 6.1.7. Let
o(CK) C [a,b], k:=b/a>1.
Then for allug € KN andi > 1

— 1\
L) luo—uafx.  (6.23)

x| —

= el < o — ua < 2(

T (55)




360 6 Solution of Linear Systems of Equations

Proof. Proposition 6.1.5 and Lemma 6.1.6 give us the first inequality. Furthermore,
we have T; (x) = cos(i arccos x) or

Ti(x) = % ((x F VXD 4 (r— Va2 - 1)") , (6.24)

while there are only even powers of v/x2 — 1 and thus (6.24) is defined for all
x € R. We then have

1 i
Y}(x)zi(x—kx/xz—l) forx > 1

and from

JE+1
(b Vo2 = Dl = 5

we obtain the assertion. O

6.1.5 Generalizations™

We will briefly discuss generalizations of Theorem 6.1.7. Firstly, the restriction to
finite-dimensional spaces K¥ is not important. The cg method can just as well be
defined for infinite-dimensional Hilbert spaces, in which case (6.23) still remains
valid if X,Y are Hilbert spaces over K, (-,-)y«x : ¥ x X — K is a sesquilinear
formand A € L(X,Y) satisfies

Vu,ve X : (Au,v)yxx = (Av,u)y.x- (6.25)

IfY =Xand A,C € L(X,Y)withCA =] 4+ K and acompact K : X — X
we can again determine a convergence rate from (6.21). In this respect we note that
the spectrum o (K) of K is discrete and only has an accumulation point at zero [see
Theorem 2.1.36(ii)]. Now let ¢ > 0 be given and let ¢(z) be a polynomial such that
q(0) =1 and

qg(r) =0 Vieo( +K);|A—1|>c¢ (6.26)

Since there are only finitely many A € o(/ + K) that satisfy the condition [A—1[ > ¢
for every ¢ > 0, g in (6.26) exists. With r(z) = (1 —z)/ and p;(2) = q(2)r(z) we
have p;(0) = 1, degree of p; = j+ degree of ¢ and

max{|p; ()| : z€ o(I + K)} <&/ max{|q(z)|:z € 0(I + K)}.

* This section should be read as a complement to the core material of this book.
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In the following u; again denotes the i-th iterate of the cg method. For all i >
degree g from (6.21) we deduce the estimate

lu; —ui |k < max{|g(z)| : z € o (I + K)}el 74D [uy —u, |k .

Proposition 6.1.8. Let X be a Hilbert space over K and CA = I + K with a
compact K : X — X. Let w; be the i-th iterate of the cg method.
Then for all ¢ > 0 there exists a constant C(g) such that for all i we have

u; —ui|x < C & [lup — usllx - (6.27)

6.2 Descent Methods for Non-symmetric Systems

‘We consider
Ku=f (6.28)

in RY with a non-symmetric K. The symmetric or skew symmetric parts of K are
given by
1 1
M = E(K+KT), R = E(K—KT). (6.29)
We then have K = M + R. For an arbitrary matrix X let A, (X) and Ayax(X) be
the eigenvalues with the smallest and largest absolute values respectively and let
p(X) = |Amax(X)| be the spectral radius of X. o(X) denotes the spectrum of X.

For a non-singular X the condition number with respect to the Euclidean norm |||
is given by «(X) = | X||[IX7!]|.

6.2.1 Descent Methods

The general form of descent methods for the solution of (6.28) is described in
Algorithm 6.2.1. Here we will restrict ourselves to the case K = R.

Algorithm 6.2.1 (Descent Method).

uo € RY (Initial Vector) (6.30a)

ro=f—Kug (6.30b)

;e ri Kpy) (6.30¢)
(Kp;. Kp;)

Ui = + o p; (6.30d)

riy1 :=1; —o; Kp; (6.30e)

Compute p; +1 - (6.30f)
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The choice (6.30c) minimizes the residual
i1l = If — K +api)|

with respect to « and therefore we have ||r; 41| < ||r;|| in every step. We still need
to determine the algorithm that provides us with p;. We set

i
pit1i=rir1+y BV p; (6.31a)
j=0
BV == — (Kr;11.Kp,) / (Kp;.Kp,) . (6.31b)

The vector p;+; from (6.30) and (6.31) minimizes E(w) := ||f — Kw| over the
affine space u ¢ + span{po, ..., p; }. (6.30) and (6.31) together define a generalized
conjugate residual method. Ignoring round-off errors it produces the solution of
(6.28) in at most N steps, just like the cg method.

Storing all the p; in (6.31a) requires too much memory for large N. Therefore
we replace (6.31a) by

i
Pitt =Titi+ ) /35-1)Pj (6.32)
j=i—k+1

for a k > 0 with ,By) as in (6.31b). Note that for k = 0 we have

Pi+1 =Ti41. (6.33)

In this case (6.30) is also called the “minimal residual method” (MR) or otherwise
Orthomin(k).

6.2.2 Convergence Rate of MR and Orthomin(k)

Lemma 6.2.2. The vectors (w;), (x;) and (p;) for the MR or Orthomin (k) satisfy

(Kpl-,Kpj):O j=i—k,....i—1,i>k, (6.34a)
(ri,Kp;) =0 j=i—-k—1,...,i—-1,i>k+1, (6.34b)
(ri,Kp;) = (ri,Kr;) . (6.34¢)

Proof. (6.34a) follows from (6.31), (6.32) by induction over i. We recommend the
proof as an exercise.
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The relation in (6.34b) follows by induction over i. Thus we let (6.34b) hold for
alli < I. Then with (6.30e) we have

(ri+1,Kp;) = (ri,Kp;) — i (Kp;, Kp;) .

Fori —k < j < i < I all terms on the right-hand side vanish, according to
the induction hypothesis and (6.34a). For j = i = I the right-hand side vanishes
because of the definition (6.30c) of «;. This shows that (6.34b) also holds in the case
i = I 4+ 1. For (6.34c) we multiply (6.31a) and (6.32) by K and then form the inner
product with r;: it follows that

i—1
(r;, Kp;) = (r;, Kr;) + BV (r; Kp;) = (ri.Kr;),
J J
j=i—k

because of (6.34b). O

Theorem 6.2.3. Let the symmetric part M of K be positive semidefinite. The sequence
(r;) of the residuals of MR or Orthomin (k) satisfies

/Xmin M 2 ’5
Il = (1= 280 ol (635)

We need a preparatory lemma for the proof.

Lemma 6.2.4. For (p;) and (r;) of MR or Orthomin(k)
(Kp;.Kp;) < (Kr;,Kr;). (6.36)

The proof uses (6.31a), (6.32) and (6.34a) and we recommend it to the reader as
an exercise.

Proof of Theorem 6.2.3. From (6.30¢e) we have

i 41 ]* = (ri.x;) — 20 (r;, Kp;) + o (Kp;, Kp;)
(r;,Kp;)? (ri,Kp;)?

= |r:f> -2
l (Kp;, Kp;) (Kp;, Kp;)
S
= |r; .
(Kp;, Kp;)

With this it follows from (6.34c) and (6.36) that
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i+l —1_ (ri. Kp;) (ri.Kp;)
[[r; [|? (ri,ri)  (Kp;,Kp;)
<1-— (l’,‘,Kl’i) (l’,‘,Kl‘i)

(ri,r;) (Kr;,Kr;)
Since (v,Rv) = 0 forall v e R¥ with R from (6.29) we have

(ri, Kr;) _ (r;, Mr;) '
(ri,l’,‘) B (ri,ri) 2/'\mm(M).

From this and from

(ri,Kr;) — (ri.r) (ri, Kri) - Amin(M)
(Kl‘l‘,KI‘l‘) - (l‘,’,KT Kl‘,’,) (I‘l‘,l‘,') - AmaX(KTK)

we have the assertion (6.35). O

6.3 Iterative Solvers for Equations of Negative Order

In this section we discuss the iterative solution of the integral equation for the single
layer operator V, i.e., an operator of the first kind and negative order.

Numerical approximations of the entries of the system matrix and the right-hand
side (see Chap. 5) or the cluster method (see Chap. 7) both lead to a perturbed system
of Galerkin equations _

Kig = 1. (6.37)

The size of the perturbations should be chosen in such a way that if the system of
equations is solved exactly the associated boundary element solution izs € S should
converge optimally. As we have already seen in Chap. 4, Lemma 4.5.1, the condition
number

K(K) = Amax (K)/Amin (K)

of the exact Galerkin matrix K for a boundary integral operator of the first kind with
order £1 on a quasi-uniform mesh G on I" with mesh width / behaves as

k(K) < Ch~' <CN'2. (6.38)

If the approximation K in (6.37) satisfies suitable stability conditions (6.38) also
holds for K, as the following exercise will show.

Exercise 6.3.1. Let K be the exact Galerkin matrix of a boundary element method
Jor an elliptic boundary integral equation of the first kind and of order —1 on a
shape-regular, quasi-uniform mesh G with mesh width h. Furthermore, let K be a
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stable, consistent, symmetric approximation of K, more precisely, we assume that
the perturbed Galerkin solution us € S from (6.37) converges at an optimal rate.
Show that the condition number of the perturbed matrix K satisfies

K(K) = Amax (K)/Amin(K) < Ch™' = CN'/? (6.39)

for a sufficiently small mesh width h < hy.

The previous exercise, together with the symmetry of the approximation K and
the convergence estimate (6.23) in Theorem 6.1.7 for the cg method, all combine
to give us estimates for the error of the approximation ﬁg after j steps of the cg
method.

For this let &’ S be the j-th iterate of the cg method applied to (6.37) and let

€S = 5; P! be the associated boundary element solution. The connection
between the Euchdean vector norm |0’ s — Ug|| of the error in the j-th iterate and
the error ||£t§ — s || g-1/2(ry in the boundary element solution is established by

normalizing the basis functions of S as follows. Since the basis (by) ;<7 of Sé’ !
is constructed separately for every panel 7, it can easily be made orthonormal with
respect to the L2(T") inner-product. In this case we have

iis =Y (is); br € S = |laslloqy = s, (6.40)
el

where ||-|| again denotes the Euclidean norm.

Proposition 6.3.2. Let K be a stable, consistent and symmetric approximation of
the Galerkin matrix K of the boundary mtegral equation of the first kind for the

single layer potential. Furthermore, let ( S) be the sequence of the iterated
0

vectors of the cg method with the initial vector uS = 0 and the approximate solu-

tions i’ 5 € S associated with u i’ - Let the basis of S be L2-orthonormal and let the
inverse inequality from Theorem 4.4.3 hold. Then the error estimate

liis — @hll 120y < C(L =R W7Y2 | £l g (6.41)

holds.

Proof. We apply the convergence estimate (6.23) with the unit matrix C = I, which
is the cg method without preconditioning, and with the matrix K. According to
Exercise 6.3.1 it follows for a sufficiently small & < hg that

k(K)y<Ch™' <CNV2,

With this, Theorem 6.1.7 gives us the estimate
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_ |
L =C |ug —ug

is — it} | <C

Y
= us —u
H—I/Z(I‘) S

‘ (6.42)
<C (1= as| = (1=r"2 B2 s -1 -

The stability of the perturbation and of the Galerkin method combined with the
ellipticity of the integral equation together yield

lasllg-12qy = Crllus | a-120) = Callullg-1720y < C3llf | mrr2ry

which gives us the assertion. O

Remark 6.3.3. The factor h="/2 in (6.41) can eventually be omitted if the Galerkin
projection is stable in L? so that ||Us| in (6.42) can be estimated in terms of the
right-hand side [ (with constants independent of h) under appropriate regularity
assumptions.

In order to obtain the order of convergence for the approximation ﬁJS, we need
to set the error bound (6.41) in the same way as for the discretization error of the
unperturbed Galerkin method. In the H~/2(I")-norm the Galerkin method con-
verges with an order of O(h?%3/2) if the exact solution u has maximal regularity,
more precisely, if we have u € HP+!(T). This means that we terminate the cg
method after jo steps, where jj is chosen so that the following condition holds

(1 - hl/z)jo B2 < CppI2, (6.43)

Proposition 6.3.4. For a sufficiently small h < hg the cg method without precon-
ditioning yields an approximation ftgo € S of the Galerkin solution us € S that
converges with an optimal order after

jo = C|logh|h™Y2 ~ CNV*log N (6.44)

steps.

We note that a cg step requires a matrix-vector multiplication u +— Ku. For
dense matrices the evaluation thereof has a complexity of O (N 2). In this case the
total complexity of the entire solution process is proportional to N°/*log N. For a
large dimension N ~ 10* — 10° this behavior leads to unacceptable computational
costs, even for modern supercomputers.

In Chap.7 we will introduce the cluster method for a fast matrix-vector multi-
plication, which only needs O (N (log N)%) arithmetic operations with a > 0. This
gives us an almost linear total complexity of O(N5/4(log N)?*1) for the cg method
without preconditioning.

Exercise 6.3.5. In Proposition 6.3.4 we assume that the approximation K of the
matrix K is symmetric. Study the case in which K is a stable, consistent and
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non-symmetric approximation of a positive definite matrix K and in which an MR
or Orthomin(k) method is used for the iterative solution of (6.37).

In many cases the complexity of the cg method and its non-symmetric variants is
reasonable so that preconditioning is not necessary.

If, however, the dimension of the linear system of equations is very large, i.e.,
N > 10, preconditioning methods can be applied to reduce the condition number.
For example, we can achieve a condition number of O (|log 4|) if we precondition
using the Haar-Multiwavelet basis of the subspace S [178,205]. Wavelet discretiza-
tions of integral equations are discussed in [190, 191, 208, 236]. In [227], [228]
and [206] a wavelet construction is described which is also suited to very complex
surfaces.

6.4 Iterative Solvers for Equations of Positive Order

Integral equations of positive order are similar to differential equations. Multi-
grid methods belong to the most efficient solution methods for finite element
discretizations. They can also be applied to integral equations without too many
modifications. In this chapter we will give an introduction to multi-grid methods that
have been adapted to integral equations. For a detailed discussion we refer to [114]
and [116].

6.4.1 Integral Equations of Positive Order

In this section we will introduce multi-grid methods for the efficient solution of
integral equations of positive order. We consider an integral operator of the form

(Ku) (x) = /Fk (x,y)u(y)dsy vx e T

T" denotes the surface of a three-dimensional domain and G denotes a surface mesh
of I".

Assumption 6.4.1. The operator K : HY? (T') — H~Y2(T') is continuous with
the continuity constant C. and elliptic on a closed subspace V.C HY2 (T):

b(v,v) =, K2y = v IVIgeq — Yvev. (6.45)

For integral equations of positive order the kernel function is usually hypersin-
gular and the integral is defined by means of a suitable regularization.
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For a right-hand side f € V' we are looking for a function u € V such that
bu,v) = f(v) Vvev. (6.46)

The Galerkin or collocation discretization transforms the integral equation into a
coefficient matrix K € CV*¥ and into the right-hand side f € C". The coefficient
vector u in the basis representation of the boundary element solution u € S is the
solution of the linear system of equations

Ku =f. (6.47)

Since it is difficult to define point evaluations for integral equations with a hyper-
singular kernel function, we will restrict ourselves to Galerkin discretizations. The
conformity § € V < HY2(T') implies the Lipschitz continuity of the bound-
ary element function. Some proofs require inverse inequalities and we denote the
minimal constant in

lull 120y < Ch™Y2 |l L2y YuesS (6.48)

by Ciy. It depends on the regularity of the mesh G [see Chap. 4, Theorem 4.4.3 and
Remark 4.4.4(a)]. The minimal and maximal constant C and ¢ in

|suppb;| < Ch®> and |suppb;| > ch? (6.49)

are denoted by Cyupp and cgypp respectively.
We will now provide an estimate for the diagonal elements of the matrix K for
later applications.

Lemma 6.4.2. There exist positive constants cq and Cq such that
cahi < |Ki;| = Cqh; VI<i<N (6.50)

with h; == max {h; : T € G A T C supp b;}. Here the constants c4, Cq4 depend only
on T, the minimal angle of the surface mesh, the constants from local inverse
inequalities and the coefficients of the kernel function.

Proof. The continuity and ellipticity (cf. Assumption 6.4.1) implies that
Vell “bl “?—11/2(1’*) = Ki,i <C ||bl “111/2(1'*) .

From Remark 4.4.4a with s = 1/2 and ¢t = 0 we deduce that

Th. 4.4

B 445
1bill 1/2qry < Ch 2 1, lzary =< Ch'/2,
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The lower estimate is proved in two steps. Recall that (b;) is a Lagrange basis.
Owing to the /-independent equivalence of the norms [[v|| ge(,) and [V e (zatine)

from Corollary 4.3.12, it suffices to consider the case of a plane polyhedral surface.

Step a: Estimate with respect to the H !-seminorm.

For a basis function b; we select some T € G with T C suppb; and denote the
reference map by y. : T — 7. Let N w = bil|, o x. denote the local shape function
for some p € L; [cf. Example 4.1.37 and (4.70)]. Then we obtain

il = i = [ 2 ®(6:' VR @), VR, @) dx

Lemma 4.3.6 ~ ~
z ch?ﬂGZ‘VNu(ﬁ),VNu(i))dﬁ (6.51)

T

with the inverse of Gram’s matrix G;' := J;' (J r_l)T and the Jacobian J; of x-.
Note that the minimal eigenvalue of G; ! is the reciprocal of the maximal eigenvalue
of G; so that from Lemma 4.3.5 and (6.51) we derive

bil g1y = ¢ ‘Nu‘

HI@®)

There exists some Z € 7 such that

“Vﬁﬂ@)“ = sup VN, &) H > 1.

The smoothness of N , implies that there exist some 7 C % and some constants
o, B €10, 1] which depend only on the polynomial degree p such that

viei o VN @] = |VN.®| ana |7]z BRI

Thus

il = ¢ [Nu| | ze|Ru| > ca| VN @) ]i] = co VBT

H(3) — H(f) —

Step b: H'/?-estimate.
From Remark 4.4.4a with s = 1 and t = 1/2 we deduce the second inequality in

A —1/2
cav/B It < |bil iy < Chy P lbill gy -
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6.4.2 Iterative Methods

In this subsection we will summarize some of the properties of iterative methods.
For a more elaborate treatment we recommend [116]. The proofs that we do not
provide here can be found in [116].

Since the large dimension of the matrix K does not allow the use of direct solution
methods (complexity O (N3)), we should use iterative methods to solve (6.47). In
the following we will consider linear iterative methods of the type:

ul+D = @ vv(Ku0> 1j (6.52)

Clearly, the iteration process is defined entirely by the choice of the matrix W and
the initial vector u(®.

Some of the common iterative methods include the Jacobi method, the Gauss—
Seidel method and the SOR method (Successive OverRelaxation method). They are
based on the decomposition

K=D-L-R (6.53)

with the diagonal matrix D := diag K, the strictly lower triangular matrix L and the
strictly upper triangular matrix R.

Example 6.4.3. The Jacobi method is defined by W = D~!. Componentwise the
iterative procedure reads

i+1 :

In many applications the method has to be damped by a parameter v > 0. The
damped Jacobi method is defined by W = oD,

Example 6.4.4. The Gauss—Seidel method is characterized by the choice W =
L - D)_l. Note that for this method the triangular matrix L. — D does not have
to be inverted. One only needs to solve a system of equations with a triangular
matrix. Componentwise this reads

@+1) _ ( ) _ @i+1) @) ;
uj’ ’ ZKJ, u +ZK w1 1<j<N.

(6.54)
One obtains the damped version by introducing a positive factor o so that W :=
o (L-D)"!

Example 6.4.5. The SOR method is obtained by introducing a parameter v > 0 in
(6.54) which yields
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G+1) _ () (+1) () ,
u ! K, ZK u’ +ZK,kuk’ f; 1<j<N.

In the following we will summarize the basic convergence results for iterative
methods of the form (6.52). We begin with the definition of convergence.

Definition 6.4.6. An iterative method of the form (6.52) is called convergent if for
all f € CV there exists a limit u of the iteration that does not depend on the initial
valueu® e CV.

The convergence of a linear iterative method can be similarly defined by means
of the spectral radius of the iteration matrix.

Definition 6.4.7. The spectral radius of a matrix A € CV*¥ s given by
p(A) := max {|A| : A is an eigenvalue of A}.

The iteration matrix of a linear iterative method of the form (6.52) is given by
T:=1-WK.

Remark 6.4.8. A linear iterative method of the form (6.52) with a regular matrix K
has the representation

ul ™ =mu® 4 1-T)K'f.
Theorem 6.4.9. The iterative method (6.52) converges if and only if p (T) < 1. The

limit of the iteration is the solution of the linear system of equations.

Proof. Theorem 3.2.7 and Corollary 3.2.8 from [116]. O

In order to assess an iterative method for a special application, quantitative con-
vergence results play a decisive role. For a vector norm ||-| on C¥ the associated
matrix norm is also denoted by ||-||.

|Av]

Al := :
vecM\goy IVl

Theorem 6.4.10. Let ||-|| be an associated matrix norm. A sufficient condition for
the convergence of an iteration (6.52) with an iteration matrix T is given by the
estimate ||T|| < 1. The error e®) := u®) — u satisfies the estimate

o] smmpel. o)<

Proof. Theorem 3.2.10 in [116]. O

The condition ||T|| < 1 is only sufficient for the convergence of the iterative
method.
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Remark 6.4.11. (a) Let ||-|| be an associated matrix norm. Then for every matrix
A € RV*N we have the estimate

p(A) = J|A]l.

(b) For every matrix A and every ¢ > 0 there exists an associated matrix norm
Il = 1Illa,e with
Al < p(A) + e

Proof. Part a: Let w be an eigenvector associated with the eigenvalue A of A with
the largest absolute value. Then

vl _ Aw] _

Al = >
vec oy IVl Wil

Al =p(A).

The proof of Part b uses the Jordan canonical form of the matrix A and can be
found in, e.g., [224, Theorem 6.9.2]. |

The remark shows that for a convergent iterative method there always exists an
associated matrix norm which satisfies the conditions from Theorem 6.4.10. For
linear systems of equations with a positive definite coefficient matrix A € CV*V,
choosing the norm

N
X[, = (x. Ax)"> with (y.Ax) = > yiA; X;

ij=1

is often a good option to prove that ||T||, < 1.

As an example, we study the convergence behavior of the Jacobi method in
dependence on the condition number of the matrix. For a detailed discussion on
iterative methods we refer to [116,225].

Theorem 6.4.12 (Jacobi Method). Let K in (6.47) be positive definite. The largest
(smallest) eigenvalue of K := D V2KD /2 js denoted by A (A). The optimal
damping parameter for the Jacobi method is given by wop; := 2/ (A + A) and the
norm of the associated iteration matrix satisfies

Kk—1
Kk+1

p(T) = |Tlx = [Ty = (6.55)

with the condition number k of K.
The following theorem will elaborate on the condition k of K.

Theorem 6.4.13. Let Assumptions 5.3.5, 5.3.25 and let (6.50) be satisfied. Let the
Galerkin matrix in (6.47) be positive definite. Then the iteration matrix of the
damped Jacobi method with an optimal damping parameter satisfies
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p(T) <1—ch,

where the positive constant ¢ depends on Ciyy [see (6.48))], Ve [see (6.45)], Ce, cq,
Cq (see Lemma 6.4.2) and the constants from Corollary 5.3.28.

Proof. We begin by estimating the largest and smallest eigenvalues of K (see
Chap. 4, proof of Lemma 4.5.1 and Exercise 4.5.2).

For a coefficient vectoru € C¥, u denotes the associated boundary element func-
tion. Since K is positive definite, we have for the largest and smallest eigenvalues
of K

Amax =  Sup (u, Ku) and Apin =  inf (u, Ku)
ueCN\(oy (U, 1) ueCM\{0} (u,u)

respectively. The estimate for the largest eigenvalue stems from the continuity of K,
the inverse inequality (6.48) and Corollary 5.3.28. Thus

(u,Ku) = (u, Ku)p2ry < llull grs2¢ry | Kull g—172ry < Ce ”””%{1/2(1“)
< CRCeh™ ullaqy < Chlul?  for Amax < Ch. (6.56)
The lower bound for the smallest eigenvalue
Amin > ch?
can be obtained from the ellipticity of K by
(w. Ku) = (0, Ki) 2y = e [l 2 = ven oy = h® full®.
Forv € CV we set u = D~/2y and obtain the estimates

Amax = C and Amin = ch

for the largest and smallest eigenvalues ;\max, imin of K from the inequalities
7% 2 -1/2 2 _~ 2
(v.Kv) = (u.Ku) < Ch [[u]®> = Ch HD VH <CIvI2, (6.57)

~ 2
(v. Kv) = (u.Ku) > ch? ju|® = ch? HD_I/ZVH > h |v|?

by using Lemma 6.4.2. "
This proves the estimate k < C A~ for the condition number of K. If we insert
this into (6.55) we obtain the assertion. O

Corollary 6.4.14. Under the conditions of Theorem 6.4.13 the spectrum of the
Galerkin discretization of K in (6.47) satisfies

o (K) C [chz, Ch]

with positive constants ¢ and C.



374 6 Solution of Linear Systems of Equations

The cg method from Sect. 6.1 is an example of a non-linear iterative method.
If the continuous boundary integral operator is symmetric and elliptic the Galerkin
discretization leads to a positive definite system matrix and the cg method becomes
applicable.

Theorem 6.4.15. Let the conditions from Theorem 6.4.13 be satisfied. The i-th
iteration in the cg method (without preconditioning) is denoted by u. Then the
iteration error ¢¥) := u® — u satisfies the estimate

o] =2(1-cva)

“l,

Proof. We apply Theorem 6.1.7. From Corollary 6.4.14 we have for k = Aax/Amin
the estimate k < Ch~!. For the estimate (6.23) we use

-1
ﬁ+ 51—Cx/l_z

<

and thus obtain the assertion. |

Remark 6.4.16. Theorem 6.4.15 implies that the number of iterations necessary to
solve the linear system of equations grows as the dimension of K increases.

Under similar conditions to those in Proposition 6.3.4 we obtain an asymptotic
complexity of O (1t x M VM) for the solution of the linear system of equations
(6.47), where §1t := (N1/4 log N) denotes the number of iterations and {M VM
the complexity of a matrix-vector multiplication. For the cluster method we have
fMVM < CN log* N witha > 0.

Remark 6.4.16 shows that the complexity for the solution of the linear system
of equations has a growth which is faster than linear-logarithmic. For very large
problems (N ~ 10> — 10°) the computational costs for the solution of the linear
system of equations will dominate the total costs. In the following subsection we
will introduce a method which can solve the linear system of equations (6.47) at a
linear-logarithmic rate.

6.4.3 Multi-grid Methods*

Multi-grid methods are well suited to solve linear systems of equations that result
from the discretization of differential operators or integral operators of positive
order. In this subsection we will introduce multi-grid methods for the problem (6.47)

* This section should be read as a complement to the core material of this book.
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and refer to the monograph [114] and the textbook [116] for a detailed treatment.
Here we will only give a brief presentation, which is adapted to boundary integral
equations of positive order.

6.4.3.1 Motivation

The elliptic integral operator K : H'/2(I') — H~'Y2(T') acts on a function
u — Ku as a differentiation. Multi-grid methods can be applied to general, elliptic
problems of positive order. The basic idea behind multi-grid methods can best be
explained by using an elliptic differential operator which has been discretized by
finite differences. Transferring this method to elliptic boundary integral equations
of positive order does not require any modification and is presented afterwards.

We consider the Poisson model problem on the unit interval / = (0, 1). Find a
function u such that

' =f in [
’ 6.58
u(0) =u(l)=0. (6.58)
For the discretization we use an equidistant mesh ® := {ih:1 <i < N} with

h:=1/(N + 1). It is our aim to determine an approximation of the solution at the
mesh points x € ©. This mesh function is denoted by u € R¥ . In order to deter-
mine a system of equations for u, the second derivative is replaced by the difference
approximation

u(x —h)+2u(x)—u(x+h)

—u" (x) ~ — 2

If we use this at every mesh point x € ® and then take the zero boundary conditions
into consideration we obtain the linear system of equations

Lu=f (6.59)

with a tridiagonal coefficient matrix L and the vector f € RY

2 -1 0 ... 0
-1 : .
L=hi2| o - o |- f,-::f(%) V1<i<N.
-1
Lo 0 -1 2

The solution u is the required approximative solution at the mesh points iz, 1 <i <
N . For this problem the eigensystem can be given explicitly.
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Proposition 6.4.17. The eigenvalues and eigenvectors (A(k),a(k)), 1<k <N,of
the matrix L are given by

o® = V2R (sin (kjhr) Y, AR = 4h2 sin? kxh

The damped Jacobi iteration applied to (6.59) can be written in the form
2
Q0D g _ @h (Lu(") _ f>
2
and we limit the damping parameter to
w €]0,1]. (6.60)

The iteration matrix is then given by
2
Jac . wh
T =1- TL
and the eigenvectors coincide with those of the matrix L. The eigenvalues read

krh
A® = 1 20 sin? % (6.61)

Lemma 6.4.18. Let (6.60) hold. Then the spectral radius of the iteration matrix
T satisfies

h 1
p (T) = 1 — 2w sin? % =1- Enzhza) + 0 (h*).
Proof. It is easy to see that A® in (6.61) assumes its maximal value for k = 1. O

This lemma explains the slow convergence of the Jacobi method for the linear
system of equations (6.59). The iteration error satisfies the recursion

et = Thce® (6.62)

N . N
We expand the vector e(!) with respect to the eigenvectors (a(k)) ke

N
e = 3 cDg®
k=1

and insert this into the representation (6.62) and thus obtain
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N
el =30 Da®  with It = cA® and A® asin (6.61).
k=1

As the index k increases, the oscillations of the eigenfunctions a® grow. The fol-
lowing lemma shows that the parts of the error () that have high oscillations are
reduced by a fixed factor with every Jacobi iteration.

Lemma 6.4.19. Let the damping parameter satisfy o = 1/2. For k > % we

have
‘A(k)‘ <12

and the associated coefficients c](C’H) of the error eV in the eigenvector repre-

sentation satisfy

- .
e+ < 172

Proof. Choosing v = 1/2 gives us

km
AR =1 —sin2 —— |
2(N +1)
and the right-hand side, considered as a function of k, 1 < k < N, is monotonically
decreasing. For k > % we thus have
(k) .2 b 1
AY <1 —sin” — = —,
- 4 2
and the assertion follows from this. O

The slow convergence of the Jacobi method can thus be explained by the slow
reduction of the low frequency parts of the error. On the other hand, the error e
is already smooth after very few iteration steps, as opposed to the solution u. The
error satisfies the equation

Le® = Lu® —Lu=Lu® —f=:d. (6.63)

The right-hand side is the negative residual of the iteration u) and in connection
with multi-grid methods it is called the defect. The vector d can be easily computed
by using the previous iteration and (6.63) represents the equation for the error ).
If one were to solve (6.63) for e®) one would have solved the original system of
equations u = u® — e® . Since (6.63) is of the same type as (6.59), the iterative
solution, e.g., with the Jacobi method, would have the same complexity as the solu-
tion of (6.59). The essential difference between (6.59) and (6.63) lies in the differing
smoothness of the solutions u and ‘). We expect that the solution of (6.63) will be
smooth after very few Jacobi steps, as opposed to the solution u.

The basic idea of a two-grid method consists in approximating the solution e®)
from (6.63) by means of a coarser discretization. For this let Lo, be the discretiza-
tion of the problem (6.58) on a coarser mesh Ocoarse := {iMcoarse : 1 < i < Neoarse}
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with Acoarse = (Neoarse + 1)_1 and Nease ~ N/2. A coefficient vector v e RY
is transported to the coarse mesh by means of a restriction R : RN — RMNeouse
and a vector w € RNeowse s prolonged to the finer mesh by means of a prolon-
gation P : RNeowse s RN Both mappings R, P will be concretely introduced in
Definition 6.4.21.

Formally one obtains the approximation &) of (6.63) in three steps, as follows:

1. Restriction of the defect in (6.63):
deoarse := Rd
2. Solving the equation for the coarse mesh

. —1
€coarse = Lcoarsedcoarse
3. Transfer to the fine mesh
é(l) = Pecoarse

The new iteration is then obtained by the correction ué+? = u® —g®,
The multi-grid method is obtained by again applying the two-grid method to the
equation

Lcoarse €coarse = Ueoarse

and then iterating this process for increasingly coarse meshes.

The multi-grid method described in this subsection can be applied to general,
elliptic differential and integral equations of positive order. It is based on the
property that classical iterative methods rapidly reduce the high-frequency parts
of the error. The more large-scale parts can then be approximated by coarser
discretizations. It is because of this reason that the iterative method within the
multi-grid algorithm is also called the smoothing method.

In the next subsection we will apply this concept to integral equations of positive
order and at the same time define the multi-grid method.

6.4.3.2 Multi-grid Method for Integral Equations of Positive Order

We have already explained in the motivation for this subsection that the efficiency of
multi-grid methods is based on a hierarchy of discretizations. Therefore we assume
that a sequence of surface meshes (g[)ﬁ";ﬂg is given and that the linear system of
equations has to be solved on the level £,,x. In the simplest case such meshes can
be obtained by refining a coarse mesh.

Example 6.4.20. Let I be the surface of a polyhedron and let Gy be a (coarse) tri-
angulation of T'. A family of fine triangulations (gg)ﬁ‘;ﬂg is obtained by recursively
connecting the midpoints of the sides of every triangle t € Gy_1 and thus subdivid-

ing t into four congruent triangles (see Remark 4.1.8). The mesh points of the mesh
N
Q¢ are denoted by (X,',()

i=1"
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On an abstract level we assume that the surface mesh G is the finest mesh of a
mesh family (gg)ﬁfgg, ie., G =Gy, , with a strictly decreasing mesh width /,. The
Galerkin discretization of the integral equation (6.46) with boundary elements on

the meshes Gy, 0 < £ < £, leads to a family of linear systems of equations
Kou, =1 0 < < Liax- (6.64)
It is our goal to efficiently solve the equation on a fine mesh
Ko B = Fl- (6.65)

To combine simple iterative methods with a coarse grid correction we need to
define transfer operators from coarse to fine meshes and vice-versa. For 0 < { <
£max We introduce the notation X; := C¥¢ for the space of mesh functions.

The canonical choice for the prolongation Py ¢_; : X;_; — X can be obtained
by interpreting a coefficient vector u € X;_; as a boundary element function. For
this we assume that the boundary element spaces Sy are nested

SoCS;C...cS¢. CcH (). (6.66)

max

The boundary element basis for S, is denoted by (b,-,g)fv:[l.

Every coefficient vector u € X,_; is uniquely associated with a boundary
element function u € Sy_; by

Ne—y
u=Pjui= Y wbi . (6.67)
i=1

which, owing to (6.66), also satisfies u € Sy. In Sy it again has a unique basis
representation

Ny
u=Y aibiy (6.68)

i=1

and the operation Sy > u — a € X, defines the operator R; : Sy — X;. The
composite mapping X¢—; > u — u — a € X defines the prolongation P; ¢ :
X[_l e X[

Definition 6.4.21. Let (6.66) hold. Let the operators P, : X; — Sy and Ry : Sy —
Xy be given by (6.67) and (6.68). The canonical prolongation Py y_; : X;—; — X;
is the composite mapping

Poo 1 =RePpy.

The restriction Ry_; ¢ : Xy — Xy is the adjoint of P; ¢_; and it is character-
ized by

(Rg_l,gv, u) = (V, P[,g_llI) Vve Xy, ue Xy_;.
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Remark 6.4.22. The canonical prolongation Py 4_, is represented by a rectangular
matrix of the dimension Ny x Ny_,. For the restriction we have Ry_; 4 = PZ 1

Example 6.4.23. The mesh hierarchy described in Example 6.4.20 has the follow-
ing property: For every mesh point X € Oy we either have X € ®y_q or there exist
two coarse mesh points y,Z € ®y_; that are connected by a panel edge and satisfy
x = (y + z) /2. In the case of continuous, piecewise linear boundary elements we
then have for the prolongation

1ifXi0=Yje-1
(Pe,e—l),-,j =bje1(Xig) = | % ifXi.0.¥).c-1 form a panel edge in Gy,
0 otherwise.

We have now defined all the components of the two-grid method and can
describe it in an algorithmic form. The application of one step of a simple itera-
tive method, for example, the Jacobi iteration, to a mesh function u; defines the
mapping S; (ug, f¢), where f; denotes the right-hand side of the associated system
of equations Kyuy, = f;. In the following algorithm we will apply this smoothing
iteration v times. The required number of smoothing iterations is estimated in The-
orem 6.4.37 according to v > v with ¥ = O (1). In many applications v = 2,3
proves to be a suitable choice.

Algorithm 6.4.24 (Two-Grid Method). The iteration step of the two-grid method
for the solution of (6.65) is called by TGM (ug,,, . f;,..) and is defined as follows.

procedure TGM (uy, fy) ;
begin

fori :=1tovdouy :=S; (uy,fy);
di—1 = Ry—10 (Keug —1£y) ;
ey =K, dey;
w i=ug— Py
(6.69)
end;

Remark 6.4.25. The two-grid method defines a linear iterative method with the
iteration matrix

T'M .= (I, — P K Re—1 e Ke) (TOM)”

where TOM denotes the iteration matrix of the simple iterative method (smooth-
ing method). For the damped Jacobi method we have, for example, TOM .=
I, — a)DZlKe.

For practical applications the two-grid method can not yet be recommended, as
on the level £ — 1 there is still one system of linear equations that has to be solved
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per iteration. The idea of the multi-grid method is to again replace the linear system
of equations
Ke—1¢p-1 = dy—;

by a two-grid method and to repeat this procedure until we reach the coarsest level
£ = 0. The method includes a control parameter y € {1, 2} which will be explained
at a later stage.

Algorithm 6.4.26 (Multi-grid Method). An iteration of the multi-grid method for
the solution of (6.65) is called by MGM ({iax, 0y, . f¢,... ) and is defined as follows.

procedure MGM (L, uy, ;) ;

begin
if { = 0 then vy := K;'fy
else begin

fori :=1tovdouy :=S; (ug,fy);

di—1 = Ry 0 (Keug —1£) ;

¢ :=0; (6.70)
fori =1toydoMGM (£ —1,¢c—1,dy—1);

w =ug — Py

end;
end;

Remark 6.4.27. It is easy to verify that the recursion in the multi-grid algorithm
reaches the level £ = 0 after {iax steps and then terminates, which means that the
algorithm is well defined.

Figure 6.1 illustrates the succession of the single recursion steps of a multi-grid
iteration for the cases y = 1,2. The names V-cycle (y = 1) and W-cycle (y = 2)
stem from the shape of the mesh transitions in Fig. 6.1.

6.4.3.3 Nested Iterations

The multi-grid iteration starts on the finest mesh, descends to the coarsest mesh level
and then prolongs the corrections over the different levels up to the finest level. In
practical applications the following situation often occurs. The finest discretization
level £, is not known a priori. We start with very coarse discretizations and the
associated Galerkin solutions are computed thereon. It is then decided whether the
current mesh needs to be refined to improve the precision. Thus the object is to
solve a sequence of linear systems of equations on the levels £ = 0, 1,2,.... This
situation can be used to the advantage of the multi-grid iteration by prolonging the
previously computed solution uy to the refined mesh G, where it in turn defines
a suitable initial value for the multi-grid iteration on the level £ + 1. This procedure
is called nested iteration and can be described in an algorithmic form as follows.
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Fig. 6.1 Schematic representation of a multi-grid iteration with a V-cycle (fop) for y = 1 and
£ = 5 and with a W-cycle (bottom) fory =2 and { = 4

Algorithm 6.4.28 (Nested Iteration). The nested iteration calls the multi-grid pro-
cedure MGM, starting with the coarsest level. Let uy := Kalfo be the solution of
the equation for the coarse mesh.

procedure Nested Iteration;
Jor € := 1to £, do
begin
ug :=Pygqupg;
Jori :=1tomydo MGM (uy,fy) ;
end;

In connection with the convergence analysis for nested iterations we will prove
that my = m = O (1) can be chosen independently of £. It turns out in practical
applications that the algorithm already converges form = 1, 2.
6.4.3.4 Convergence Analysis for Multi-grid Methods
The proof of convergence for the multi-grid method is subdivided into an analysis
of the smoothing property and an analysis of the coarse grid correction. For the sake
of clarity we will first consider the convergence of the two-grid method.

Convergence of the Two-Grid Method

In Sect.6.4.3.1 we called a mesh function smooth if coefficients in the expansion
with respect to the eigenvectors of the system matrix have small absolute value
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for the eigenvectors of high frequency. Since we are considering integral operators
of positive order, the smoothness can also be described by the measure ”KgTze },

where e denotes the current iteration error and Sév) denotes the v-fold application of
the smoothing iteration. Here and in the following ||-|| denotes the Euclidean norm.

Definition 6.4.29 (Smoothing Property). A smoothing iteration with iteration
matrix Ty, £ > 0, satisfies the smoothing property with the exponent s € R if
there exist functions 7 (v) and v () that are independent of £ such that:

L KTy | <n)hys YO <v <D(h), £>1.
2. lim n(v) =0.
V—>00
3. limv(h) =00 or v (h) = oo.
h—0
Theorem 6.4.30. Let the conditions from Theorem 6.4.13 be satisfied for the matri-
ces Ky, 0 < £ < Lyax, from (6.64). Then there exist 0 < w < w < 1 independent

of the refinement of the discretization such that the smoothing property holds for the
damped Jacobi method for all w € [w, w] with exponent s = —1 and v (h) = oo.

Proof. For the sake of simplicity we will omit the index £ in the proof. We have
1
KT’ = K (I - wD"'K)" = —D'/2X (1 - X)" D'/2 6.71)
1)
with the positive definite matrix X = @D ~/2KD~'/2. From (6.57) we have
o (D_I/ZKD_1/2> c0,C]
with a constant C which is independent of the refinement of the discretization. If
we choose w € [c, C_l] with 0 < ¢ < C~! the spectrum of X is contained in the
interval [0, 1]. It is shown in Lemma 6.4.31 that this yields
IXAX=X)"| < no(v)
with 79 (v) from (6.72). Lemma 6.4.2 implies that
2
o] =cn
from which we have the assertion by using the Cauchy—Schwarz inequality. O
Lemma 6.4.31. (a) Let X be a positive definite matrix for which I — X is also

positive definite. Then
IX@X=X)"] <no(v)

for all v > 0, where the function 1o (v) is defined by

o (v) :==v"/ (v + 1), (6.72)
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(b) The asymptotic behavior of no (v) as v — oo is given by

B )= +0 (7).

Proof. 1t is well known from linear algebra (see [116, Theorem 2.8.1]) that for every
matrix A € CV*V there exist a unitary matrix Q and an upper triangular matrix U
such that

A = QUQ”.

By means of induction one can show that for a polynomial p the representation

p(A) =QpU)Q¥

is valid. It follows from the theorem on determinant multiplication that the charac-
teristic polynomials of p (A) and p (U) coincide. Since the product of two upper
triangular matrices is again an upper triangular matrix, it follows by induction that
p (U) is an upper triangular matrix with the diagonal elements (p (U)); ; = p (U; ;).
As{U;; : 1 <i < N} isthe spectrum o (A) of A we have proved that

o(p(A) =pA):={p@A):ieca(A)}.

Since X is positive definite, so is B := X (I — X)” and with p (§) = § (1 —§)"
we thus have

[XX-X)"| = max{1:1 €0 B)} =max{p(A): A€o (X)}
<max{p(§):£€[0,1]}.

Simple analysis provides the maximum & = (v + 1)~! as well as the equality

1

1 4
P(fo)=1+—v(1—m) =170 (v).

Part (b) follows by analyzing 7. O

The iteration matrix of the two-grid method has the representation (see Remark
6.4.25)
TTOM .= (K;' — Pr -1 K Reo1 ) KT} (6.73)

and can be estimated in the Euclidean norm as
[T76M | < K7t = P K Recr o KTy (6.74)

We have already estimated the second factor on the right-hand side in connec-
tion with the smoothing property in Theorem 6.4.30. The first factor compares the
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Galerkin solution on different mesh levels and is therefore called the approximation
property.

Definition 6.4.32 (Approximation Property). The two-grid method has the appro-
ximation property with the exponent s € R if

|K;! —Peo K Reoi | < ChS (6.75)

with a constant C which is independent of €, £ .., and hy.

In order to prove the approximation property for the two-grid method we need
the following assumption.

Assumption 6.4.33. There exists a constant Cg > 0 such that for all right-hand
sides f € L?(T') the Galerkin solution ug € Sy of (6.46) for the mesh Gy satisfies
the estimate

||l — W“LZ(F) < Cghy ||.f||L2(F) ’

where u denotes the continuous solution of (6.46).

Lemma 6.4.34. Let Assumption 6.4.1 be satisfied and let the inverse operator
K':L2() - H' (I

be continuous. Let the mesh family Gy be quasi-uniform and let the boundary ele-
ment space Se(l) satisfy Se(l) C Sy, where Se(l) denotes the continuous, piecewise

linear boundary element space. Let the conditions from Theorem 4.2.17 be satisfied.
Then Assumption 6.4.33 holds.

Proof. For f € L? (I") the continuous solution satisfies u € H! (I"). With Proposi-
tion 4.1.46 and the quasi-optimality of the Galerkin discretization we have

lu—uell g2y = € inf |lu = vl g2y < C inf Jlu—v||g1/2(r) -
VGS[ VGSél)

The approximation property (see Proposition 4.1.50) and the regularity of the
integral operator K yield

3 1/2 1/2
1n(fl) lu =Vl gr2qy < Ch/ lull gy < Ch/ If N2y -
veS,

The estimate
lu—uell 2y < Che | f 2
follows by the Aubin—Nitsche duality argument (see Theorem 4.2.17). O
In order to prove the approximation property, first for the two-grid and then

for the multi-grid method, we need a weak condition on the relation between
consecutive mesh widths.
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Assumption 6.4.35. The mesh widths hy, 0 < £ < L%, satisfy
1 <hg/hg—y <Cy (6.76)

with constants ¢q, C1 that do not depend on £.

Theorem 6.4.36. Let Assumptions 5.3.5, 5.3.25, 6.4.33 and 6.4.35 be satisfied. Let
the Galerkin matrix in (6.47) be positive definite.

Then the two-grid method has the approximation property with exponent s = —1,
where the positive constant C in (6.75) does not depend on the mesh width hy but
does depend on the shape-regularity of the mesh.

Proof. Letf; € CN¢ be arbitrary. We set Ay := K;' =Py 1K' R_1 ¢ and prove
that | Afe || < Chy' e

(a) In the first step we construct a continuous function f; € Sy with the property
that f; is the right-hand side of the Galerkin discretization. We use the ansatz

Ne
fe="Bribe

i=1

and from the condition ( fe, bz,,-) 2T = (fe);» 1 < i < Ny, we determine the
coefficient vector B¢ as the solution of the linear system of equations

Ny

Zﬁe,j (be,j,bz,i)Lz(r) = (fy); 1<i <N,
j=1

N,
By using the matrix My := ((be’j , be’i)Lz(F))- 1? . we obtain the compact repre-
i,j=
sentation
Be = M 'f,. (6.77)

(b) In the second step the vectorsug := K 'fyandug ¢y :=Py 1K' Ry_y fy
are interpreted as Galerkin solutions of auxiliary problems.

The vector uy is the coefficient vector of the Galerkin solution of problem (6.46):
Find uy € Sy such that

b (Lt[, V) = (f(v V)LZ(F) Vv e S[.

We now consider ug ¢—; and set f;_; := Ry_; ¢fy. The corresponding right-hand
side fy—p is defined by
Ne—y
fior =Y Bevibeov

i=1
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with
ﬂ[—l = Mz_llff—l .

Therefore the vector ug_; = Ke__llfg_l is the coefficient vector of the Galerkin
solution: Find uy_; € Sy_1 such that

b (ug—1,v) = (fe—1,v) L2(r) Vv e Se-1.
Then we have ug g1 := Py g_juy_;.

(c) Splitting the term Afy.
By Definition 6.4.21 we obtain

Ay =wg—wg 1 = Roug — Py Rg—qug—y1.
If weuse Py g1 = RgPy—y and Py Ry = Iy— on Sy_; we obtain
ug —ug 1 = R (ug —ug—1).
(d) By using Corollary 5.3.28 we have for the norms of Ry, Py

cphelull < [[Peuflp2ry < Cphy Jul,

15— Z1g— (6.78)
Cplhy Null Loy < IReull < cpthgt ull L2y
for all u € Sy and u € CV. Hence we have proved that
Jue =gt || < Chyt flue = uell L2y - (6.79)

If we insert the continuous solution u of (6.46) with f = f; into the right-hand side
of (6.79) we obtain

e =g || < Chy' (lug — ull g2y + llu—werll2qry) - (6.80)

(e) Estimating the differences uy — v and u — uy—
Assumption 6.4.33 yields

lug —ull 20y < Chell fell L2y -

and
lwg—1 —ull 2y < Che—y |l fo-1ll L2y -
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(f) Estimating the functions f;, fy—1
In the following the norms || f¢|| 12 (ry and || f¢—1 || L2(r) are expressed in terms of
the vector f;. We have

I fellL2@y = ChellBell (6.81)

and similarly
I fe-1llz2y = Che—y [Be-all- (6.82)

We first estimate the norm of B,. We have

-1 -1
IBell = [|Mz e || < A, IIEell
with the smallest eigenvalue A, of the positive definite matrix M. We can estimate
this value by
(v, M,v) inf (Pev, Pev) 2y _ inf ||P4V||2LZ(r)

Amin = inf = in > > ch%.
vechntoy (v,v) veCNe\{0} (v, v) vech\wy v
(6.83)

With (6.81) it follows that
I fell < Chygt (Il

We now turn our attention to (6.82). The definitions of 8¢_; and f;_; combined with
(6.83) and (6.76) yield

1Berll = ML £ || < chi? [fe—1]l = chy? |Re-refe| < chi? [Re-i e lIfell-
We still need to estimate the norm of the operator Ry_; . With (6.78) we have
[Re-1e = [PLoos] = [Pl < IRAIPI =€ (684
so that in all we have proved that
I fell < Chg" lifell  and | feorllL2qry < Chly Ifel -
(g) Estimating the operator A
The approximation property follows from
©80)
IAefell = [ug —wg || < Chy' (lug —ull 2y + llu—ug—1llz2ry) (6.85)
(e _
< Chy' (he | fell oy + et L femtll 2 qry)
) _
< Chy'|ife]l.
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Theorem 6.4.37. Let the conditions from Theorems 6.4.30 and 6.4.36 be satisfied.
Then there exist 0 < @ < w < 1 and v > 0 independent of the refinement of the
discretization so that the norm of the two-grid method converges with respect to the
Euclidean norm with v > v smoothing steps of the Jacobi method. The damping
parameter w € [w,w] is independent of the mesh width h and the discretization
level L. For the iteration matrix the estimate

[rec] <

holds.
Proof. Combine the decomposition (6.74) with Theorems 6.4.30 and 6.4.36. O

W-Cycle Convergence

In the next step we will prove the convergence of the multi-grid method. The conver-
gence proofs for the W and V-cycles are very different. We begin with the simpler
W-cycle multi-grid algorithm. The proof makes use of the fact that the multi-grid
method (W-cycle) can be regarded as a small perturbation of the two-grid algorithm.
We require an additional condition which will be stated next.

Assumption 6.4.38. The iteration matrix Ty of the smoothing iteration satisfies
Itz = G
forall > 1and0 < v <V = ming>q v (hy) with v from Definition 6.4.29.

This assumption is satisfied for the Jacobi method.

Lemma 6.4.39. Let the conditions from Theorem 6.4. 13 be satisfied for the matrices
Ky, 0 < £ < Liax, from (6.64) and let 0 < w < @ be as in Theorem 6.4.30. Then
the damped Jacobi method satisfies Assumption 6.4.38 for all w € [w, ®].

Proof. For the Jacobi method we have
T := (I, — wD;'K¢)" = D; "% (I, - X,)" D}/? (6.86)

with X, from (6.71).
For diagonal matrices D; we have

-1/2 1/2
o2 o] <c.

As was already shown in the proof of Theorem 6.4.30, the matrix in the brack-
ets on the right-hand side of (6.86) satisfies ||[I; — X¢|| < 1. The Cauchy—Schwarz
inequality then yields the assertion. O
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Lemma 6.4.40. Let Assumptions 5.3.5, 5.3.25, 6.4.35 and 6.4.38 be satisfied. Let
Ty denote the iteration matrix for the smoothing method and Ctgym the norm of the
iteration matrix of the two-grid method. Then

1K i Re—1, (KT} || < ¢ (Cie + Cram)
Proof. We use the decomposition
Py K R KTy = T — (K" = Pp e K Re1¢) KTy

By Assumption 6.4.38, the first summand on the right-hand side satisfies the esti-
mate ||T; || < Cj and the second summand is the iteration matrix of the two-grid
method. It then follows that

[Pee— 1 K2 Re-1 KTy | < Cio + Crom.
Corollary 5.3.28 [see (6.78)] and Assumption 6.4.35 yield
[Pee—rv] = IR Peorvll = crhy ' 1Pe—avlioqry = c2hiy her IV = e3 |1v]

from which we have the assertion. O

In the next theorem we derive a recursive representation for the iteration matrix
of the multi-grid method.

Theorem 6.4.41. Let Ty be the iteration matrix for the smoothing method and let
T[TGM be the iteration matrix for the two-grid method with respect to the levels
L, £ — 1. The iteration matrix Té” GM of the multi-grid method can be recursively

represented as
TéWGM — 0’ TIIWGM — T{GM,

14
T%GM = TZGM + P o1 (T%?M) Kg__llRZ—l,ZKKTZ~

Proof. The proof is achieved by induction over the levels { = 0,1,....For{ =0, 1
the statement is clear, since the solution is exact on the level £ = 0 and since on the
level £ = 1 the multi-grid method and the two-grid method are identical.

In order to identify the iteration matrix T?GC of the coarse grid correction, we
use (6.70) and set f; = 0. Then

do—1 = Re—1 (Kpuy.

If we denote the first iterate ¢y—; = 0 in (6.70) by céo_)l and the iterate belonging to

the index i in (6.70) by cg_)l we obtain

@) MGM ,(i—1) MGM
¢ty =T e + N dey
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with the matrix N?’f ?M = (Ig_l —T?’f ?M ) KZ_II (see Remark 6.4.8). Since

¢ = 0t follows that

y—1 . y—1 )
o= (e ) wetacc = (£ (e ) s w9 it
i=0 i=0
= (Ig_1 — (Té‘/[_ﬁM)y> K[__lle_l’nglIz.
The iteration matrix of the coarse grid correction (6.70) is then given by

Y
T{OC =T — Py (IZ—I - (T%?M) )KZ—llRf—lle
— — 4 -
= (K" =P 1 K Reo1,0) Ke + Py (T%?M) Ko Re1 Ky,
(6.87)

Combined with the preceding smoothing step T, and with (6.73) we obtain the
assertion

Y
T%GM — TZGM +P(,[—l (T%?M) KZ_IIRZ_I,[K(TZ

O

As an abbreviation we set {y = ”Té"’ M ” In the following we will derive a
recursive estimate for £.

Lemma 6.4.42. Let Assumptions 5.3.5, 5.3.25, 6.4.35 and 6.4.38 be satisfied. For
the numbers g the recursive estimate

Co=0  andforl <€ <Ly :{ < “TeTGMH +C¢,

holds, where C depends only on ||T£TGM H, cp, Cp from (6.78), c1, Cy from (6.76)
and Cy, from (6.4.38).

Proof. The recursive representation of the iteration matrix of the multi-grid method
from Theorem 6.4.41 can be estimated by using the triangle and Cauchy—Schwarz
inequalities as follows:

’

Zo = 0, ¢ = HTgGM

e e P A [N e
Lemma 6.4.40 and Py oy = Ry Py—; with (6.78) then yield

¢ < | 1FoM| + e (6.88)
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with a constant C, which depends only on H TZTGM ,cp, Cp from (6.78), c1, C;
from (6.76) and Cj; from (6.4.38). O

Theorem 6.4.43. Let the conditions from Lemma 6.4.42 be satisfied.
Then there exists a constant v > 0 such that the iteration matrix for the multi-grid
method with W-cycle and v > v smoothing steps satisfies the estimate

freov < <

with a constant C which is independent of £ and the mesh width hy.

Proof. The W-cycle is defined by choosing y = 2 in Algorithm 6.4.26. Without loss
of generality we assume in (6.88) that

C, > 1. (6.89)
We define an auxiliary sequence (xg)ﬁ";‘g by xo := O and for £ = 1,2,..., nax

by x; =1+ nx%_l with = CrgmCx«. We clearly have {; < Crgmxg for all
0 <€ < lmax and (xz)ﬁm“" is strictly increasing. In the case n < 1/4 the auxiliary

=0
sequence is bounded (for example, by 2) and the limit x, is given by
14+ J/T=4
* — 277 .

Combining these results we have shown that under the condition CtgmCy < 1/4
the norm of the iteration matrix of the multi-grid method (W-cycle) satisfies the
estimate [see (6.89)]

1+«/1—4T] _ 1+\/1_4CTGMC* <C_1 <1
2n 2C, - '

¢e < Crom

By (6.72) the minimal number of smoothing steps can always be chosen such that
the associated two-grid method satisfies CtgmCy < 1/4. O

V-Cycle Convergence

The above argument cannot be applied to the V-cycle. Since the multi-grid iteration
with the V-cycle requires far less computational time than the W-cycle, we will also
present the more complicated convergence analysis associated with it.

The essential differences compared to the W-cycle convergence consist in restrict-
ing the method to symmetric smoothers and using convergence results with respect
to the energy norm |-k, instead of the Euclidean norm. We will specify these
assumptions in the following.
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Assumption 6.4.44. The matrices Ky are positive definite. For the restriction we
have Ry_1 4 = PZ ¢y forall L.

In the next step the multi-grid (and two-grid) method is generalized to form a
symmetric method.

Definition 6.4.45. Let K be positive definite and let a smoothing method S, (u(i ), f)
of the form (6.52) be given. The adjoint smoothing method S¥ (u(i ), f) is given by

ul D = g _wH (Ku(i) —f) :

Definition 6.4.46. The symmetric multi-grid (and two-grid) method results by
adding v post-smoothing steps with the adjoint smoothing iteration. The following
lines

fori :=1tovdouy := Sf (ug,fy);

have to be added to the end of the program in (6.70) [and (6.69)].

For the V-cycle we assume that the coarse mesh matrices are defined by the
Galerkin product
Ko—1 =Ry (K¢Pp 1. (6.90)

Remark 6.4.47. By Assumption 6.4.44 we have for the Galerkin product
Ke-1 = Pz,e_lKePz,e—y

Assumption 6.4.48. The smoothing method is Hermitian: Wfl = Wy forall0 <
e S emax~

For positive definite system matrices Ky the matrices We_1 — Ky are also positive
definite.

Assuming these conditions, the iteration matrix for the symmetric two-grid
method is given by

TN = Ty (!~ P KR ) KT

Lemma 6.4.49. Let Assumptions 5.3.5 and 5.3.25 be satisfied. Let the Galerkin
matrix in (6.47) be positive definite. Then, for a sufficiently small parameter domain
0 < w < w, the Jacobi method satisfies Assumption 6.4.48 for all damping
parameters ® € @, ®].

Proof. For the damped Jacobi method we have WZI = w 'Dy. For positive
definite system matrices, Wy is therefore also Hermitian and the first part from
Assumption 6.4.48 is satisfied.
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From Lemma 6.4.2 we have
[We | = ot
and, by (6.56), the system matrix K, satisfies the estimate
IKell < Che.
It then follows that the smallest eigenvalue A, of Wzl — Ky satisfies
Amin = (co™ = C) hy.

Therefore WZI — Ky is positive definite for all damping parameters 0 < w < ¢/C.
|

The V-cycle convergence is proved in terms of the energy norm ||-[|g,. For this
we need the approximation property of multi-grid methods in terms of the energy
norm.

Assumption 6.4.50. Forall 1 < { < {,,x we have
sz_l/z (Kg' =P K R ) W' P2 H <Ca

with a constant Ca which is independent of £, £ .« and the mesh width hy.

Lemma 6.4.51. Let the conditions from Theorem 6.4.36 hold. Then Assumption
6.4.50 is satisfied for the Jacobi method.

Proof. We combine the statement
|KG " =Pt K2 Ry | < Cuy!
from Theorem 6.4.36 with Lemma 6.4.2
] ] <2 oy = o
and obtain
HWZI/Z (K7 —Peet K Reop ) W, /2 H < CiGo™>

O

We have now gathered all the necessary conditions for the convergence of the
V-cycle multi-grid method and have used the damped Jacobi method as a smoothing
iteration to check its validity. The iteration matrix for the multi-grid method with
V-cycle is denoted by TX.
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Theorem 6.4.52. Let Assumptions 6.4.44, 6.4.48, 6.4.50 and (6.90) be satisfied.
Then the symmetric multi-grid method as a V-cycle converges in the energy norm at
the following rate

Ca

<A 6.91
K~ Cat2v 691

o(10) = ||

Proof. (see [116, Theorem 10.7.15]). The recursion from Theorem 6.4.41 can be
simplified for the V-cycle (y = 1) to

Ty =0, Ve>1:T) =TFM L 1P, T) K Ry (K T). (6.92)
To make use of the symmetric structure of the V-cycle, we insert the transformations

TIOM .= K,>TTOMK, 2, 1) = K,*TVK, /2,
Po1 = K;/ZPZ,Z—IKZ_I{27 Re—14 = KZ_I{ZRe—l,zKé/Z,

into (6.92) and use (6.73) to obtain the representation

1 = KTV = AT AR T R 1)

=107 (L = Prer (T =Ty ) Reor o) T (6.93)
= T}” (Qe + lv’z,e_lfev_llie—l,e) T (6.94)

with ) )
Q=T =Py 1R 1. (6.95)

It follows from Assumption 6.4.44, 6.4.48 and (6.90) that Q% =Q/ = Q?. There-
fore the mapping Qg is an orthogonal projection (see Exercise 6.4.53) and is thus
positive semidefinite. By induction and with (6.94) the property “T(‘)/ is positive
semidefinite” is transferred to "I‘Z forall £ > 0.

Then the Euclidean norm of TX is given by the largest eigenvalue of TX and we
have the equivalence of the two statements (6.96), (6.97)

|1, = 7] = 2 (696)
o (TZ) C[0. 8. (6.97)

We assume by induction that o ('f}/_l) C [0,&p—1] with &g—; = Ca/ (Ca + 2v).

Since ’i‘g = 0, this assumption is clearly satisfied for £ = 0.
The spectral radius p () (see Definition 6.4.7) coincides with the largest eigen-
value for positive semidefinite matrices. From (6.93) and Exercise 6.4.53 we obtain
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P (T}/) <p (T?)) (Ie — (1 =8¢-1) f’z,e—1ﬁz—1,e) T?)))
=p (T (1 = ) Qe + Ea 1) 1) (6.98)
It follows from the approximation property (see Assumption 6.4.50) that
p (Kg' —Pe 1K' Re—i¢) < Cap (Wy)

(see Exercise 6.4.53.c). The eigenvalue inequality (see Exercise 6.4.53.d) is inserted

into the transformation Ké/ 2 ) K}/ 2 which yields the following spectral estimate

for Qg
0<pQ)=p (Ie - KZ/ZPZ,Z—IKZ_IIRZ—I,ZKéﬂ)
< Cap(Xe) with X =K PWK]"?,

The projection property of Q implies the alternative estimate o (Q¢) < [0, 1].
Therefore we have for all « € [0, 1]

0= p(Qu) = aCap (Xe) +(1-0).
This inequality, substituted in (6.98), yields
p(TF) = o (T (1= g0 («CaXe + 1 =) L) + &1 1) T7) . (6.99)
Weset 8 := (1 —{y—1) (1 —a) + {y—1 and note that for all ¢ € [0, 1] we have the

inclusion 8 € [{y—1, 1]. By using this relation to express « in terms of 8 we obtain
the estimate for (6.99)

p(TV) =p (T (1 =P CaXe + 1) T7) Vo =p=1. (6.100)
The matrix ’i‘?) has the representation
. B v v
TV — KPR = (1Z _ K;/ZWgK;/Z) = (1Z —Xg) .

Therefore the matrix on the right-hand side of (6.100) in the argument of p is the
polynomial

[ EB) = (1= ((1-B)Caé + B)

with £ = X,. Therefore the expression

m(B) :=max{f (§.6):0=§=<1}
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is an upper bound for the spectral radius. We choose B = {;—1 = Ca/ (Ca + 2v).
An analysis of the function f (-,{¢—;) shows that it is strictly decreasing with
respect to the first argument within the parameter domain under consideration. It
follows that

p(TV) = £0.80) =ty
and by induction we have {; = Cx/ (Ca + 2v). The fact that (6.96) and (6.97) are
equivalent finally yields the stated estimate in (6.91).

The left-hand equality in (6.91) follows from the similarity of the matrices TZ
and ’i‘g as given by

71, = e = 1] = (1) = o (17).

Exercise 6.4.53.
Prove the following:

(a) Let Assumptions 6.4.44, 6.4.48 and (6.90) be satisfied. Let the matrices Ky be
positive definite for all £. Then Qg from (6.95) is an orthogonal projection.
(b) Let A, B be two positive definite matrices. Then

p(A+B)<p(A)+p(B).
(c) For positive definite matrices A, B the spectral inequality
p(B) < Cp(A™")

Follows from HA1/2BA1/2H <cC.
(d) Let A, B, C be positive definite. Then p (A) < p (B) yields the inequality

0 (Cl/zAC1/2> <p <C1/2BC1/2> _

Convergence of the Nested Iteration

In this subsection we will present the convergence analysis for the nested iteration
(Algorithm 6.4.28). To do this we begin with suitable assumptions concerning the
prolongation and the multi-grid method which is called in every iteration.

Assumption 6.4.54. Let uy, uy_1 be solutions of (6.64) for successive mesh levels
and let Py ¢ be the prolongation in Algorithm 6.4.28. Then

|ue —Peeyues || < Ciagt ife]l and  |Peey| < Ca



398 6 Solution of Linear Systems of Equations

Assumption 6.4.55. The multi-grid method which is called in Algorithm 6.4.28 has
a mesh-independent convergence rate:

oM <c <1 ez,

Remark 6.4.56. The first estimate from Assumption 6.4.54 follows from (6.85) if
the conditions of Theorem 6.4.36 are given:

[ue = Pee—que—y | < Chyt |Ifell.

The second estimate follows with (6.84) if the conditions of Theorem 6.4.36 are
given.

Assumption 6.4.55 corresponds to the statements from Theorems 6.4.43 and 6.4.52.
We will only consider the convergence analysis for the L? and Euclidean norm. We
remind the reader that the V-cycle convergence was only proved in the energy norm.
The convergence of the nested iteration in the energy norm can be derived similarly
and is recommended as an exercise.

Let f be the continuous right-hand side in (6.46). Then the right-hand side f; in
(6.64) can be estimated by using

)il == [(Lbed) oyl = 1 W2 (suppbes) 1060 1 2 (suppies) = Che LS 2 (supp)

and the finite intersection of the supports. The estimate is given by
Ifell < Cshe Il f L2y < oo (6.101)

The convergence of the nested iteration can be shown under these conditions. If
a vector a € RV¢ and a function a € Sy appear in the same context their relation is

givenby a = ZINZZI ajby;.

Theorem 6.4.57. Let Assumptions 6.4.54, 6.4.55 hold and let (6.78 ), (6.101) be
satisfied. Let the iteration number my = m in Algorithm 6.4.28 satisfy

Czc;lé‘”' <1

with cp from (6.78). Then the nested iteration yields approximations Wy of the exact
solution uy of (6.64) which satisfy the error estimate

g — digll L2y < & (€™) C1CrAe |1 f 2 (6.102)
with c
3X
X) = ——
g () 1—Cacp'x

if the initial value u satisfies inequality (6.102).
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Proof. According to the conditions, we have (6.102) for £ = 0. We make the recur-
sive assumption that (6.102) is satisfied for the levels < £ — 1. The initial error
u? — uy with ug := Py g1y can be estimated by

[u —ug| < [Pre—rup—y —ue| + ||Peer (We—y — i)
< |Pee—rwe—y —ug| + |Pee—r | llue—y — ey ||
< Cih' ||l + Ca [lug—y — gy |
< GGl f L2y + Cacp by Nug—y — itg—1ll 22y
<C (G + Cacp's (™)) (FAVERSE

Estimate (6.78) implies for the associated boundary element functions that
|ug —ue] 2y = C1CP (C3 + Cacp' g €™) e [l f 1l 2y -

After m iterations the initial error u2 — uy on the level £ is reduced as described by
the multi-grid convergence properties

! = el 2y < & 0 = e oy < {87 (Cs + Caci ' g (€™} CiCrhe |1 f | ory-

The definition of g implies that {. ..} = g (¢™) and from this we have the assertion.
O

Exercise 6.4.58. Prove the convergence of the nested iteration for the multi-grid
method with V-cycle under suitable conditions.

6.5 Multi-grid Methods for Equations of Negative
Order*

The efficiency of multi-grid methods consists in the combination of the smoothing
properties of the operator and the smoothing method as well as the approximation
property of the coarse grid correction. The smoothing property is closely connected
with the mapping properties of the operator K : H* (I') — H~*(I") with s > 0.
For operators of negative order (example: single layer potential) the operator and
the associated simple iterative method are no longer smoothing. High-frequency
eigenfunctions correspond to small eigenvalues and vice-versa.

* This section should be regarded as a complement to the actual focus of the book.
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In this subsection we present an approach with which the mapping properties of
the integral operators of negative order are reversed. This in turn allows the applica-
tion of multi-grid methods. This approach is due to Bramble, Leyk and Pasciak (see
[29,30]).

As a model problem we consider the Galerkin discretization of the boundary
integral equation for the single layer potential V : H~Y/2(I") — HY2(T"). Let
f € H'2 (") be given and let the bilinear form b : H~Y/2(I") x H~Y/2(I') - R
be defined as

v(X)u
b(u,v):=Vu,v)2ry = /1: - %dsydsx. (6.103)

S c H~'2(T) denotes the boundary element space and the Galerkin solution is
characterized by
VvweS: bu,v)y=f().

The basis representation u = vazl u; b; transfers the problem to the linear system
of equations
Vu=f (6.104)

and our aim is its efficient solution. For simplicity we assume here that V is symmet-
ric and positive definite (see Proposition 4.1.24). Perturbations, for example, due to
numerical quadrature, can be treated as in Exercise 6.3.1 or 6.3.5.

Definition 6.5.1. The surface gradient of a function u € H' (I') is given by
Vru := yoVZu

with the trace extension Z from Theorem 2.6.11 and the trace operator yo from
Theorem 2.6.8.

With this the bilinear form w : H' (I') x H' (I') — R can be defined by
w(u,v) = [ ((Vru, Vrv) + uwv) dx Yu,ve H'(I'). (6.105)
r

In order to avoid technical difficulties we assume that the boundary element space
satisfies the inclusion
ScH'(I. (6.106)

The Galerkin discretization of the bilinear form w yields the sparse matrix
W, := W(bi,bj) V1<i,j<N.
Proposition 6.5.2. The bilinear form w in (6.105) is H' (I")-elliptic.

Proof. The statement follows directly from w (u, u) = ||u||§11(r). O
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A direct consequence is the fact that the matrix W is positive definite. The oper-
ator W : H'(I') — H™'(T") can be associated with the bilinear form as given
by

Wu,v)g—ryxm @y = w (4, v) Yu,ve H' (T).

The connection between the continuous operators W and V' and the matrices W and
V will be studied in the following.

First let P and R be as in Definition 6.4.21, while the index £ is omitted here.
The mapping T : H~! (I') — R¥ is defined by

N -
Tf = ((fbdra)iy VS EHTHD).
Finally, the mass or Gram matrix is given as in (6.77) by

Mj’,' = (bi’bj)L2(l") lfi,ij.
Therefore the L2-orthogonal projection Q : H* (I') — S for s € [0, 1] has the

representation Q = PM™1T.

Proposition 6.5.3. Let u € S and let u = (u J)iv be the associated coefficient
vector. Then
(WM™ 'Vu), = (WOVu,bi)2(r) -

Proof. The assertion follows from

(WOVub) oy = (WPMT'TVib) gy = (WPMT (Vb ae)izy b))

n=1

N
1Vu bm,b;) Z 1Vu W,~Y,,,=(WM_1Vu)l..
LZ(F) i

O

The matrix-matrix multiplication WM™!V corresponds to the Galerkin dis-
cretization of the composition WQV. This composition approximates the operator
W V. For smooth surfaces, I' € C, it is possible to show the mapping prop-
erties WV : HS(I') — H* '(T') and the continuous invertibility (W V)~!
HS™1(T) — H® (T) (see [29]).

Since the matrix WM ™!V is the product of positive definite matrices, it is regular
and the eigenvalues are real and positive. Therefore the solution of the linear system
of equations

WM 'Vu = WM™ 'f (6.107)

solves (6.104). Since WMV can be considered as the discretization of the contin-
uous, regular operator WV of order +1, the multi-grid method from Sect. 6.4.3 can
be directly used for the solution of (6.107). It is essential for the efficiency of the
method that W be sparse so that a matrix-vector multiplication with a complexity of
O (N) can be implemented. For the convergence analysis we refer to [29-31].
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6.6 Further Remarks and Results on Iterative Solvers of BIEs

From the convergence bounds for the basic algorithms for the iterative numeri-
cal solution of the large, densely populated linear systems of equations, it is clear
that preconditioning is an important issue. This is particularly so on complicated
geometries, and for parameter dependent boundary integral operators which arise
in acoustic and electromagnetic scattering. In particular, in Galerkin BEM for BIEs
arising in electromagnetic scattering, the large, nontrivial null space of the electric
field boundary integral equation stalls most “black-box” iterative solvers.

Here, construction of a wave number dependent preconditioner is essential and
highly nontrivial. One approach towards such preconditioners is the use of the
Calder6n projector for electromagnetic scattering. This was proposed and analyzed
in [65-67]. The preconditioners thus obtained are based on suitable discretizations
of, in the Calderén projector, conjugate boundary integral operators and require
therefore the discretization of these additional boundary integral operators.

The question of how to preserve the Calderén identities under discretization
was answered recently, in the case of electromagnetic scattering, with tools from
algebraic geometry in [4,38].



Chapter 7
Cluster Methods

Partial differential equations can be directly discretized by means of difference
methods or finite element methods (domain methods). For this, a mesh has to be
generated over the d-dimensional domain €2, which is a difficult task for compli-
cated geometries and exterior domains — if the domain is unbounded the generation
of a mesh with finitely many mesh cells is impossible, leading to further compli-
cations. In comparison, the generation of a (d — 1)-dimensional surface mesh for
the boundary element method is a much simpler task. The latter method has the
additional advantage that the degrees of freedom only occur on the surface and the
dimension of the system of equations is decidedly smaller than for domain meth-
ods. If, for example, we generate a mesh of the unit cube in R3 with a uniform
Cartesian mesh and use the number of mesh points N as degrees of freedom then
only O (N?/3) of these actually lie on the surface, which means that in the BEM the
dimension of the system matrix is significantly reduced (in proportion to the number
of degrees of freedom). On the other hand, difference methods and finite elements
lead to sparse system matrices. This means that the memory requirements only grow
linearly as a function of the number of unknowns. At first glance this seems to be
a disadvantage of the matrix representation of boundary integral operators, where
the system matrices are dense. Storing these would repeal the advantage gained by
reducing the dimension of the computational domain through the boundary element
method. In the example considered above, one would need O (N') memory units to
store the system matrix for the domain discretization and O (N*/3) flops for the
boundary element method. The cluster methods use an alternative (approximative)
representation of the discrete integral operator and allows the storage of the opera-
tor with O (N log“ N) memory units, where N denotes the number of degrees of
freedom on the surface and k¥ & 4 — 6 depends on the problem.

Direct elimination methods such as the Gauss or Cholesky decompositions are
not suited to higher-dimensional problems as their complexity grows cubically with
respect to the dimension. Iterative methods prove to be much more efficient. The
cluster representation of the integral operator allows matrix-vector multiplications,
which are the elementary operations in iterative methods for linear systems of equa-
tions, to be performed in O (N log® N) arithmetic operations. The representation
does, however, not permit the use of direct elimination methods, as the matrix
elements are usually not evaluated. The cluster method was first developed for

S.A. Sauter and C. Schwab, Boundary Element Methods, Springer Series 403
in Computational Mathematics 39, DOI 10.1007/978-3-540-68093-2_7,
© Springer-Verlag Berlin Heidelberg 2011
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collocation methods and is due to W. Hackbusch and Z.P. Nowak (see [123, 124]).
The extension to Galerkin methods was introduced in [125, 197]. Closely related
to the panel clustering method is the multipole method which has been developed
independently (see [193]).

We will first introduce and describe the cluster method on an abstract level. Then
we will present the algorithmic description of the method. We will conclude this
chapter with an analysis of the error in the Galerkin solution introduced by the panel
clustering approximation and of the overall complexity of the algorithm.

Note: According to the reader’s specific interests, there are different ways of
reading this chapter. Here are a few guidelines.

For readers that are interested in the concrete, algorithmic realization of the clus-
ter method we recommend studying the Sects. 7.1.1,7.1.2,7.1.3.1,7.1.4.4and 7.2.1
in detail. The required orders of expansion can be found in Table (7.73).

If the main point of interest is the abstract error analysis of the Galerkin method
perturbed by the cluster method we recommend Sects. 7.1.1, 7.1.3.3, the introduc-
tion to Sect. 7.1.4 and Sect. 7.3.2.

Readers that are interested in the derivation of local error estimates for the
Cebysev interpolation should focus on Sects. 7.1.3.1 and 7.3.1.1.

Finally, understanding the complexity estimates in Sect. 7.4 requires a certain
knowledge of Sects.7.1.2,7.1.3.3 and 7.1.4.4.

7.1 The Cluster Algorithm

7.1.1 Conditions on the Integral Operator

We will first define the cluster method for Galerkin discretizations. In Sect. 7.5 we
will present the necessary modifications for collocation methods.

Let G be a given boundary element mesh on a surface I' and let K be an abstract
boundary integral operator of the form

K [u] (x) := /Fk (x,y) u(y)dsy forallx € I (7.1

The following assumption describes the class of kernel functions that will be
considered in this section.

Assumption 7.1.1. The kernel functionk : I' xI' — C is the directional derivative
of a global kernel function G : R? x R¢ — C that is smooth for X # y:

k (X7 Y) = DnyG (X’ y) ’ (72)

with the differential operators Dy, Dy of order 0 or 1.
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The cluster method will be formulated for this class of integral operators. We will
impose further conditions on the global kernel function G once we deal with results
on convergence and complexity.

Example 7.1.2. For the kernel function of the single layer potential, G is given by
the fundamental solution (3.3) and k (x,y) := G (x—Y).

For the kernel function of the double layer potential we have
k (x,y) = y1,G (x—y) with y1 = (nyo, A grad- + 2b-) [see (2.107)].

For the kernel function of the adjoint double layer potential we have
k (x,y) = y1xG (x —y) with y1 = (nyo, A grad-).

The kernel function of the hypersingular operator (without integration by parts,
see Sect. 3.3.4) satisfies k (X,y) = y1xV1,yG (X—Y).

7.1.2 Cluster Tree and Admissible Covering

The cluster method is based on an approximation of the kernel function on I x T".
More precisely, first the global kernel function G : R? x R4 — C is approximated
in suitable domains, from which the approximation of the actual kernel function
is constructed. Our approach consists in using the cluster algorithm to represent
and evaluate the Galerkin discretization of boundary integral equations in a mem-
ory efficient way. We begin by clustering the degrees of freedom of the Galerkin
discretization (as opposed to directly clustering the panels). The advantage of this
approach lies in the fact that the algorithmic realization is simpler than the alter-
native approach, i.e., defining the clusters as the union of panels. This factor is
especially relevant to the realization of data structures. The set of degrees of freedom
is denoted by 7 [see, for example, (4.28)].

Definition 7.1.3. A cluster is the union of one or more indices from 7.

The efficiency of the cluster method is based on the organization of the index set
in a hierarchical cluster tree.

Definition 7.1.4. The nodes of the cluster tree 7 are clusters. The set of all nodes
is denoted by T and satisfies:

1. Zisanodeof T.
2. The set of leaves Leaves (7) C T of 7 corresponds to the degrees of freedom
i € 7 and is given by

Leaves (7) :={{i}:i € Z}.

3. For every node ¢ from T\ Leaves (7) there exists a minimal set X (¢) of nodes
in T\ {o} that satisfies

o= |J & (7.3)

0€X(o)
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The set X (o) is called the sons of o. The father father () of acluster6 € T\ {Z}
is that cluster o = father () € T withé € X (0).

The edges of the cluster tree 7 are those pairs of nodes (o, s) € T x T that satisfy
eithero € X (s) or s € X (0).

If the cluster tree 7 is clear from the context we will write “Leaves” instead of
“Leaves (7).

We emphasize that the clustering concept is not restricted to boundary element
methods but is an abstract concept for organizing large sets as hierarchical trees (see
[118,119]). The following example illustrates the clustering of a set of panels.

Example 7.1.5. Let {.x € N be chosen and fixed. We set N = 2bmx gnd h =
(N — 1)~'. The mesh points x; == (i —1)h, 1 < i < N, form the set I. A mesh
of the interval (0, 1) is given by the panels t; = (xj—1,x;), 2 < i < N. The set of
nodes T of the cluster tree consists of the clusters

i—1 i—1 i

26N+J,ﬂ N+l””7N, VO <l <Ly, 1<i<2t

Oig =

The set of sons of a node o; g € T\ Leaves is given by
T (01,¢) = {02i-1,641.02i 041} -
For L. = 3 the cluster tree is illustrated in the following figure.

{1,2,3,4,5,6,7,8}

v N
{1,2,3,4} {5,6,7.8}
v \ \ N
{1,2} 3.4} {5,6} {7.8}
. . VN N
2y 8y W 550 6 {7 {8

In the next step each cluster o € T is assigned a geometric cluster and a diam-
eter. The basis functions of the boundary element space are again denoted by b;,
iel.

Definition 7.1.6. Every cluster o € T is associated with a geometric cluster I'c CI:
Iy = U supp b; .
i€0

The cluster box Q. of a cluster o € T is the minimal axiparallel cuboid which
contains ;. The cluster center M. is the center of mass of the cluster box.
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The cluster diameter is given by

diamo = sup |x—y|.
x,y€00

In the original version (see [124]) of the cluster method the size of a cluster was
determined by using the minimal ball that contains I';. Using cuboids, the sides of
which are parallel to the coordinate axes (which we will henceforth call axiparallel
cuboids), is advantageous from an algorithmic point of view and we have chosen
that approach here.

Note that neither the cluster tree nor its generation from the set Z is unique. In the
following we will present a construction which only requires the index set Z and the
associated surface pieces I';y as its input. With the notation from Definition 7.1.6,
Q7 denotes the minimal axiparallel cuboid that contains I'. For an arbitrary cuboid
QO we define the set of sons by

3 (Q) : set of the 8 congruent subcuboids

e (7.4)
that result by bisecting the edges of Q.

Remark 7.1.7. Fora set o C R3, Box () denotes the minimal axiparallel cuboid

that contains w. Note that Box (t) can easily be determined for panels t € G as is
Box (Box (w1) U Box (wy)) if Box (w;), i = 1,2, is known.

The cluster tree is generated “in steps”. The statements
£:=0; L:=1 T :=1; E =0, generate_cluster_tree(L);

generates the cluster tree, where the subroutine generate_cluster_tree is defined as
follows.

Algorithm 7.1.8 (Cluster Tree).
Comment: Generating the tree structure:

procedure generate cluster _tree(L) ;
begin
Jorall o € L do begin
initialize ¥ (0) 1= 0;
generate (temporarily) the set ¥ (Qy) ;
Jorall Q € ¥ (Qy) do begin
initialize a (temporary) node s := @;
foralli codoif Mgy € Qdos:=sU{i};
ifs #@ands # o then X (0) := X (0) U {s};
end;
L:=X0)UL\{o};T:=TUX(0);
end;
if L # 0 then generate cluster _tree(L) ;
end;
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Comment: Generating the cluster boxes.
Comment: Initialization:

Sforalli € Tdo Qg :=9;
forallt € Gandall (b; : suppb; N1 # @) do Qg := Box (Qgy U Box (1)) ;
Comment: For the remaining clusters:
Tiemp := T\ Leaves; for all ¢ € Tjepmp do generate_clusterbox(c, Tiemp, Oc) :
Comment: The procedure generate_clusterbox is defined as follows:
procedure generate clusterbox (c, Tyemp, Oc) ;
begin
forall ¢ € X (c) do begin
if Q¢ has not yet been generated then generate_clusterbox (¢, Tremp, Q) ;

Q¢ = Box (Q:U 0Q¢);
end;
Tiemp = Tremp\ {c};
end;
Comment: Computation of the cluster diameter:

forall c € T do diamc := diam Q_;

Remark 7.1.9. The construction ensures that a cluster c is either a leaf, i.e., ¢ =
{i} for some i € I, or has a non-empty set of sons that are all different from o.

Remark 7.1.10. The subdivision of a cluster is controlled by the geometric subdi-
vision of the associated axiparallel box. Alternatively, the subdivision can also be
controlled by the cardinality of the sons. Here the index set o is divided in such a
way that the cardinality of the sons is as large as possible. However, for the purpose
of error estimates the geometric subdivision is more advantageous.

A pair of clusters (0,s) € T x T is uniquely associated with a submatrix by
K9 = (K, j)ieo. The idea of the cluster method consists in finding an approxi-
€s

mate representation of such submatrices with significantly reduced memory
requirements. This entails a reduced complexity for arithmetic operations such as
multiplying a matrix block by a vector. The approximation can be applied to sub-
matrices K@) for which the cluster pair (o, s) is sufficiently well separated. The
details are given in the following definition.

Definition 7.1.11. (a) The distance between two clusters o, s € T is given by

dist (o, 5) := inf x—y|. (7.5)
(©:5) (x,5)€Q00 % Qs | Y

(b) For n € Rs¢ two clusters g, s € T are called admissible if

ndist (o, s) > max {diam o, diam s} .
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The admissibility condition allows the matrix, or rather the index set 7 x Z,
to be decomposed into admissible cluster pairs and non-admissible pairs of single
indices. On the admissible cluster pairs the associated submatrices are replaced by
the cluster method representation and on the non-admissible index pairs the associ-
ated matrix elements are computed and stored in the conventional manner. The set
of admissible cluster pairs in this decomposition is denoted by P/4” and the set of
non-admissible index pairs by P . The union P/4" U P"¢" yields the decomposi-
tion P. It is essential for the efficiency that this (non-unique) decomposition consist
of as few elements as possible. For the algorithmic realization we need a structure
of descendants and predecessors on the set of cluster pairs. For (0,5) € T x T we
define

Y(0)x X (s) (o,5)€ (T\Leaves) x (T\ Leaves),
3 (o) x {s} (0,5) € (T'\ Leaves) x Leaves,

{o} x Z(s) (0,5) € Leaves x (T'\ Leaves) ,

@ (0, 5) € Leaves x Leaves.

Y (o,5) 1=

The program line
prear .— pfr.— g. divide (ZxZ, P, Pf“’) :

generates this decomposition, where the recursive subroutine divide is defined as
follows.

Algorithm 7.1.12.

procedure divide((c,s) , P"", P/r) ;
begin
if (¢, s) is admissible then P/4" := P/2" U {(c,s)}
else if (c,s) € Leaves x Leaves then P := P"*“" U {(c,s)}
else for all (¢,5) € 3 (0, s) do divide((¢,5) , P"", Pf‘”) :
end;

The data structures for the algorithmic realization of the cluster method should
be chosen in such a way that, for every degree of freedom, the set of the associated
near-field degrees of freedom and, for every cluster, the set of associated far-field
clusters are stored. Fori € Z and ¢ € T we define

P™ ({i}) == {{j} € Leaves : ({i},{j}) € P™"}, (7.6)
P () = {o eT:(c,0)e Pf‘”}. 1.7

7.1.3 Approximation of the Kernel Function

The kernel function is approximated on admissible pairs of geometric clusters. In
the first step the global kernel function G is approximated on three-dimensional
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domains and then the approximation of the kernel function k is defined as the
directional derivative of this expansion. Here we consider the approximation by
interpolation in detail and briefly summarize possible alternatives.

7.1.3.1 Cebysev Interpolation

Interpolation is well suited for the kernel approximation because of its easy algo-
rithmic implementation and because of the fact that it can be applied to a large class
of kernel functions.

In this section we will introduce the éebyéev interpolation algorithmically. The
error analysis can be found in Sect.7.3. For a detailed introduction to Lagrange
interpolation we refer to [225] and [99].

The space of all three-dimensional polynomials of maximal degree m in every
component is denoted by Q,,

m
. i ko
Qm = E o j kX X3X5 ta; jx €C o (7.8)
i,j,k=0

Let D Cc R3andlet f € C°(D) be a continuous function. The interpolation
problem reads: For a given set of nodes Z = {E(’) 1 <i < q} C D find a function
p € Q-1 such that

pE=rE  Viez (7.9)

This problem does not have a solution in general. On axiparallel cuboids and Carte-
sian interpolation nodes the solution of the interpolation problem can, however, be
easily formulated. To do this we introduce, for m € Ny, the sets

In={peN>|V1<i<3:1=<p; <m}. (7.10)

Convention 7.1.13. Fora = (a;)}_;, b = (b;)}_, € R> we will always assume
in the following that b; > a;, 1 < i < 3, and consider axiparallel cuboids of the
form Qayp = [a1,b1] X [az, ba] X a3, b3]. The associated coordinate intervals are

denoted by Q;l,?) =la;,b;i], 1 <i <3.

Definition 7.1.14 (Tensorized Lagrange basis). Let / := [a, b] be a real interval
with b > a. Let {g(U, ED ., E(m)} C I be a set of points with

a=§80 <@ < gD g —

Fori = 1,2,...,m the Lagrange polynomial LU : | — R for the interpolation
node £ is given by
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m )]
(i,m) . X E
L2 @) = H LD g0
J?él

Le_t Con\(ention 7.1._13 hold. Let the mesh Z = Z; x 2, x Z3 with Z; =
(gD £@D [ gmDY 1 < j < 3, be given. For u € Jpu we set £ =

(E (i i ))?:1 € Z. With this the tensorized Lagrange basis is given by
L (sm) (x) := LH1m) (x1) 1 (2.m) (x2) 1 (13.m) (x3) .

The nodes £ and the associated Lagrange functions generally depend on the
interval / and the order m. The index m in £ and L*™) will always be omitted
in the following, assuming that it is clear from the context.

The Lagrange basis functions L are polynomials of maximal degree m — 1 in
every component and have the property

1 forx=§W
L - ’
® { 0 forx €2\ {£4.
Let a and b be as in Convention 7.1.13 and let the mesh Z on the cuboid Q, ) be
as in Definition 7.1.14. Then the solution of the interpolation problem (7.9) can be
given explicitly as
P =Y f(£9) 19 0. (7.11)

HETm

The choice of the Cebysev nodes as interpolation nodes has stability advantages
compared to the equidistant division of the intervals. The following classical error
representation illustrates to what extend the interpolation error depends on the
choice of interpolation nodes.

Theorem 7.1.15. Letb > a, I = [a,b]and f € C™ (I). For a set of interpolation
nodes Z = (é‘(’)):n:l we set pm = Y v f (E(’)) LY. Then for all x € I there
exists some 0y € I such that

m (0,
f(x) = pm(x) = S ()l'[ ( E(’)) (7.12)

m!
Choosing the CebySev nodes minimizes the product I, (x — é(i)) in the
error term. We will first introduce the CebySev nodes for the interval [—1, 1] and
summarize some of the properties of the CebySev polynomials.

The Ceby3ev polynomials can be recursively defined by Ty (x) := 1, T} (x) := x
and fork = 2,3,... by

Tie1 (x) := 2xTg (x) — Tie—1 (x) . (7.13)
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We obtain, for example,
Th (x) =2x2 -1, Ts (x) = 4x3 — 3x, T4 (x) = 8x* —8x%2 + 1.

Their roots are real, pairwise different and lie in the interval [—1, 1]. More precisely,
for the Cebysev polynomial 7,,, n > 1, they have the form

Definition 7.1.16 (Cebysev Interpolation on [—1, 1]). The Cebysev interpolation
of a continuous function f € C°([—1,1]) is given by

nem[f]:= if (g(z‘)) 1®
i=1
with respect to the nodes (E @ )):.nzl.
For u € N3 andx = (x,-);”:1 the tensorized Ceby3ev polynomials are given by
Ty (x) := Ty, (1) Ty (x2) Tpy (x3). (7.14)

For the three-dimensional unit cube Q = [ x I x [ with I = [-1,1] the
interpolation nodes are given by the tensorized one-dimensional CebySev nodes

£ (Elgui)x’_ e Tm.

=1

Definition 7.1.17 (Cebysev Interpolation on Q). The Ceby3ev interpolation of a
continuous function f € C°(Q) is given by

o [f]:= 3 f(g(u)) LW

WETm

For an axiparallel cuboid Q, ) we define the Cebysev interpolation by means of
the affine transformation y : Q — Q, given by

, 3
X (X) = (di + (b; —ai)x’;Ll)'

The transformed Cebygev nodes form the set

@Z’,’J) = {X (5(")) N IR= Jm}.



7.1 The Cluster Algorithm 413

Definition 7.1.18 (éeby§ev Interpolation on Q, ). The éebyéev interpolation of
a continuous function f € @,y is given by

A=Y f(g(lb))L(u)7

(m)
S(M) e®aAh

where the Lagrange functions correspond to the set @g’,?.

The approximation of the kernel function starts with the approximation of the
global kernel function on a pair of axiparallel cuboids Q,p % Q4.

Definition 7.1.19 (éebyéev Interpolation on Q,p, x Qca). For f € C%(Qap x
Q..a) the tensorized Cebysev interpolation is given by

A eal/ 1y = > > 7 (§9.0W) LW LW ().

S(M)e®;ﬁ) ;(v)e@gg)

In Assumption 7.1.1 we restricted ourselves to kernel functions that were either
the global kernel function or a derivative thereof. We define the approximation of
the kernel function by applying the derivatives in (7.2) to the global kernel function.

Definition 7.1.20 (éebyéev Approximation of the Kernel Function). Let b =
(0,5) € PJfar be a pair of admissible clusters and let 'y, I's be the associated
geometric clusters. The cluster boxes are denoted by Qs =: Qap and Q5 =: Q.
Let the kernel function have the representation

k (x,y) = DxDyG (x,y)

and let it satisfy Assumption 7.1.1. Then the CebySev approximation k, : Ty X
I's — C of the kernel function is given by

ky = DyDyTI ™

(a.b].[c.a] O

The representation of the kernel approximation in separated coordinates plays
the key role for the efficiency of the cluster method. For b = (0,s5) € P/ we
obtain the abstract representation of the kernel approximation

Ky ()= > ke (b) @Y (x) W) (y) (7.15)

L VELY,
with
tn = T K () 1= G (§0,¢) 000 (x) 1= DLW (x),
W (y) = DyL® (). (7.16)
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Definition 7.1.21. Let » € P/2". An approximation k;, of the kernel function is
semi-separable if the x and y dependence is factored as in (7.15).

7.1.3.2 Multipole Expansion

The multipole expansion was originally developed for the Laplace problem. In con-
trast to the six-dimensional expansion for the Ceby3ev interpolation, the multipole
expansion is four-dimensional and thus more efficient. However, the expansion
has to be developed for each kernel function separately in contrast to the more
general interpolation-based approach for the panel-clustering method. So far, multi-
pole expansions are developed for the Laplace problem, linear elasticity, and the
Helmbholtz problem. In the following we will give the expansion of the bound-
ary integral operator for the single layer potential of the Laplace problem, more
specifically, for the kernel function of the Coulomb potential in R3

kxy) = |x—y|™".

which is the fundamental solution of the Laplace operator up to a factor (4m)~ 1t
can be shown that the multipole expansion and the Taylor expansion are identical if
the Cartesian coordinates are replaced by spherical coordinates. For a detailed study
we refer to [77,78,110,111,193,194].

Definition 7.1.22. Let b = (0,s) € P /4" be an admissible block and let Og, Os
be the associated axiparallel cuboid. The kernel expansion for the block b is about
the point M, := M, — M; with the centers of mass My, Mg of Oy, Qs (see
Definition 7.1.6).

The multipole expansion (cf. [111]) uses the spherical harmonics Y;” and the
associated Legendre functions P;" as expansion functions. For £,m € Ny with
m < { we have (cf. [1, 8.6.6])

m d\"
PP (x) = (=)™ (1-22)""? (a) Py (x)

with the Legendre polynomials

1 d\* ¢
Py (X) zze—e'(a) (xz—l) s £ € Np.

For{ € Ngandm € Z with |[m| < £ the spherical harmonics have the representation

Y (X) := com Pgml (cos ) '™ XES,
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with

’

e+ —|m)!
Cm =N 4m (€ + m))!

where (6, ¢) € [0, ] x [0, 27| denote the spherical coordinates of the point x on
the unit sphere S,. For an admissible block b = (0, 5) € P/%" we define expansion
coefficients

1 M, - M
K (b) := yH2tv2 (|S—U)

+
Cpizl? My — M [P (M — Mo |

with

ilml

JEC=m) €+ m)!

and expansion functions in (7.15) given by

m

¢

_ x—M
q)((ru) (x) 1= \ch(yu) (x) := C/flz [Ix — Mg ||*! Ymuz (”X_MU”) :
o

The kernel approximation on I'y x T’y of the order m = my, is thus given by

kp(y) = Y kuw (0) DY () W (y)
(Wsv)EUR
with
0<pu<m

— < <

=) ez?xzg?. | TP =R2=R L 7.17

lm (. v) X 0<wvi <m— ( )

—V1 <V <V

7.1.3.3 Abstract Cluster Approximation

The CebySev interpolation and the multipole expansion are two examples for
approximating the kernel function by a semi-separable expansion. For special ker-
nel functions other expansions may be more suitable. The following assumption
summarizes the abstract conditions for the approximation by the cluster method.

Assumption 7.1.23. There exist an admissibility condition on the set of all cluster
pairs and constants 0 < y < 1,0 < C < oo and s € R with the following property:
For all admissible blocks b = (c, ) € P47 there exists a family of semi-separable

approximations {k,gm) e xTg — (C} N of the form
me

P&y =Y ko (b) @P (x) W (y) (7.18)
(V) Etm
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with

k(x,y) =k (x,y)| < Cy™dist™ (c,0) V(x.y) € TexTo.  (7.19)

Furthermore, there exist constants d1,d» € N and 0 < C < 0o such that the index
sets Ly, have the property L, C 7.9 x 792 for allm € N and such that the one-sided
restrictions

Ly = {v |3pu e 2% : (v, p) € Lm} and Ry = {u |FvezZ% (v, e Lm}
(7.20)
satisfy the conditions
BLw <C (m+ D% and Ry < C (m + 1)%2,

[v| <C(m+1) forallv e Ly URy,
L C Ly
Ho<m<M.
Row C Rt } forall0 <m <
Remark 7.1.24. The functions <1>§“ ), \IJ((,V) and the coefficients k., (b) in the expan-
sion (7.18) usually depend on the order of expansion m.

Exercise 7.1.25. Show that the index set i, from (7.16) and (7.17) satisfies the
conditions from Assumption 7.1.23 imposed on the index sets Ly, and Ry,.

7.1.4 The Matrix-Vector Multiplication in the Cluster Format

The representation of the integral operator by the cluster method can now be for-
mulated with the help of the near and far-fields P and P/4" and the abstract
approximations kj (x,y). In the following note that the boundary elements t € G
are images of the open reference element 7.

The Figs. 7.1 and 7.2 illustrate the memory organization for the cluster method
and the algorithm for the matrix-vector multiplication.

For a boundary element function u € S we denote the coefficient vector in the
basis representation by u € RZ, where again the set of degrees of freedom Z is used
to index the basis functions:

u= Z u; b,’.

ieT
The decomposition of the index set Z x Z in P U P/4" induces the representation
(Kuvpemy= Y. Vi, [ b (x) / k (x,y)b; (y) dsydsy

CGRYDY 2 : r

+ Z Z viu; / bi (x)k (x,y)b; (y) dsxdsy

b=(c.0)ePfar (i,))e(c,0) TexTo
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Fig. 7.1 Memory scheme for the cluster algorithm. The near-field matrix K" and expansion
coefficients «, , (b) are stored in the block structure P, the shift coefficients yVLH o )/URM » in the

cluster tree structure and the basis expansion coefficients L({f)}, R( (y in the vector structure

with ['; as in Definition 7.1.6. If we replace the kernel function on the block I'; x '
by the abstract cluster approximation we obtain the cluster approximation of the
integral operator.

Definition 7.1.26 (Cluster Method Approximation of the Bilinear Form). Let an
order of expansion m € Ny and a family of local kernel approximations be given
as in Assumption 7.1.23. Then the cluster approximation of the sesquilinear form
(Ku,v)2(ry is given by

(KPCu? V)Lz(l") = (Knearu, V) + Z Z K, (b) Lgv) (V) R((Tu') (u)
b=(c,0)eP/ar (v,iL)€m
(7.21)
with the sparse near-field matrix

Kpear): = frb (X) [k (.¥) b; (y)dsydsy if ({i},{j}) € P,
e otherwise
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upward recursion
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Fig. 7.2 Computation scheme for the cluster method: upward recursion, cluster—cluster interaction
and downward recursion

and the far-field coefficients

LY (v) = Zvl / bi (x) @ (x)dsy and

iec

M%m—zm/b@wwww (7.22)

LEO
forallc,o0 e Tandv € Ly, 4 € Ry.

Note that the integrals in (7.22) can be reduced to integrals over I'; N supp b; and
' N supp b;, which means that they are each the sum of a small number (bounded
independent of the mesh width) of integrals over single panels.

In the following we will deal with the efficient evaluation of the representation
(7.21) by means of the cluster hierarchy.

The explicit choice of the order of expansion 7 depends on the precision required
from the cluster approximation. The cluster pairs (¢, o) € P/4” correspond to the
non-local character of the integral operators. In order to achieve an efficient algo-
rithm, the coupling between the clusters is broken up wherever possible so as to
be able to perform the computations separately on the single clusters. This will be
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done by a one-sided restriction of the index sets and by inheritance of block sizes
on clusters.

It is essential for the efficient realization of the cluster algorithm that the function
oriented representation (7.21) be translated into an algebraic coefficient repre-
sentation. We begin with the near-field and recall the definition of the index set
[see (7.6)]

PH({i}) = {{j} € Leaves : ({i}.{j}) € P""}.
Remark 7.1.27. For the elements of the near-field matrix we have
K" =0 Viel V{j} ¢ P"™ {i}).

The matrix Ki/" is sparse, which here means that per line i we only need to
store the coefficients for the indices {j} € P"" ({i}). We can then implement a
matrix-vector multiplication with the near-field matrix as given by

> Kru, > KM, (7.23)
Jje€T {jYePrear((i})

For the far-field, first, the index set ¢,, is separated [see (7.20)]: we define
Rmn W) :={p €Rm: (v, L) € tm} Vv e Ly,.

Then we have
tm ={(v,n) | veLy,andpue R,y (v)}. (7.24)

By means of the one-sided restrictions pJfar (c) [see (7.7)] we obtain for the second
summand in (7.21) the representation (see Exercise 7.1.28)

DY LY ) BY (w) (7.25)
ceTveLy
with
BOw:= Y > ku(®R¥ . (7.26)

oePSar(c)p€Rm ()
Exercise 7.1.28. Prove the representations (7.25) and (7.26).

The sum in (7.26) corresponds to the evaluation of the cluster—cluster coupling:
The indices v on one cluster ¢ are coupled with the indices i on another cluster o
via the expansion coefficients k, ;, ().

We still need to define the efficient evaluation of the sum in (7.25) and the far-
field coefficients. For both tasks we use the hierarchical structure of the cluster tree
to evaluate recursively the approximation by the cluster method.
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7.1.4.1 Computation the Far-Field Coefficients

For the recursive calculation of the far-field coefficients by means of the cluster
tree it does not suffice that the index set Z is organized hierarchically in the cluster
tree. We also require the expansion functions ®¢ and ¥
structure formalized in the abstract Assumption 7.1.30 below.

We would like to motivate the abstract Assumption 7.1.30 by a concrete example.
If the monomials (centered in the cluster centers M.) are used as a basis of the
expansion system, i.e.,

to have a hierarchical

dM (x) 1= (x — M,)" /v! forallc € T and v € Ly,
we have for the restrictions to the sons

@g") Ir.= Z ]/v’uj@gu) forallc e T,¢c € £ (c) andallv € L, (7.27)
MELM

with the coefficients

Mz —M)" ™
- v,

Vo 1= T (7.28)
0 otherwise.

Exercise 7.1.29. Prove the representation (7.27).

The hierarchy of the approximation system is abstractly formulated in Assump-
tion 7.1.30.

Assumption 7.1.30. Forallc,o € T, all sons ¢ € X (c), 6 € X (0) and expansion
functions {@gv)} and {IIJ((TV)} , the refinement relations
VEL, VERm

oM ro= Y yE 0 and U o= Y yR U (729)
WELm HERm

hold with suitable shift coefficients y‘f‘u o yfﬂ s €C.

The computation of the far-field coefficients R((,v) (u) begins with the comput-
ing and storing of the basis far-field coefficients for every index (leaf) i € Z. The
definition of the far-field coefficients implies that

R(V)

) — f ) b (0) W) (x)dsy ifi = .
{J} 1 - Qllpp j

0 otherwise,
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and we define the basis far-field coefficients by

RY) :=RY (i)  VieI. VveRy.

By using these coefficients we obtain a recursion for the calculation of the

coefficients RS (u):

1. For all leaves i € 7 compute

R () = R{})

o, (7.30)

2. For all clusters o € T'\ Leaves recursively calculate from the leaves to the roots

R(()‘V) (u) = Z Z anu,,&RéM) (u) forallv € R,,. (7.31)
geX(0) MERm

The representation (7.30) follows directly from the linearity of the functional
R[(,v) and from the representation (7.22). For the representation (7.31) we used the
additivity of the integral, more specifically, we used the decomposition

RY @) = wi [ b 0w ) ds,
To

i€o

> Yu [ v was
T's

6eX(o) ied

Z Z Zl/fu,&ui [r bi (x) ‘Pém (X) dsy

UERm 6€X(0) i €G

YooY R W,

0eX(0) LERm

which in turn uses the geometric hierarchy (7.3) of the cluster tree and the refinement
relation (7.29).

7.1.4.2 Cluster—Cluster Interaction

In order to compute the coefficients Bc(v) (u) we use the representation (7.26). The
algorithmic evaluation of the sum is then a recursive procedure.

7.1.4.3 Evaluating the Cluster Approximation of a Matrix-Vector
Multiplication

The evaluation of the sum (7.25) can be described as a transposition of the upwards
recursion [see (7.31)]. The cluster parts Bc(v) (u) that were already computed in
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(7.26) are distributed to the sons. For this we consider the local situation of a cluster
¢ € T\ Leaves with sons X (¢). The sum in (7.25) includes all clusters from 7.
Therefore the sum over {c} U X (c¢) appears as a partial sum

Z Lgv) (bi) BC(V) (u) + Z Z Lg‘) D) BCSM) (u) . (7.32)

veLm ZeT(c) WELm

If we replace L§”’ (b;) in the first term by the refinement relation (7.29) [see (7.31)]

LOBiy= > > yE LY ()

ceX(c) MELm

we obtain the representation (7.33) for (7.32)

YoY L BB+ Y vh e BO . (733)

ceX(c) MELm VEL

The recursion for the evaluation of the sum (7.25) is based on an update of the

multipliers Bc(v) (u) in (7.25) as given by the brackets {...} in (7.33). The modified
multipliers are recursively calculated from the root to the leaves and then only have
to be multiplied by the basis far-field coefficients. These only have to be calculated
once and can then be stored. For all i € 7 these are defined by

LY .= ®Wpids Vv e Ly (7.34)
{i} Ty {i}

With these coefficients, the recursion for the evaluation of the matrix-vector multi-
plication can be formulated by means of the known quantities:

1. For ¢ = Z: For all u € L£,, we define
B™ (u) := BM (u). (7.35)
2. For all clusters ¢ € T\ {Z}, calculate recursively from the roots to the leaves:

Eg’“ (u) == BCSM) (u) + Z yE BY () Ve eX(c), Viu € L.

MsE
vELm
(7.36)
3. The cluster approximation of the component (Ku); is then given by
(Ku); = (Kyeqw); + Y LIVBE (). (7.37)

MELM
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7.1.4.4 Algorithmic Description of the Cluster Method

As an overview, we will summarize all steps of the cluster method in this subsection.

Algorithm 7.1.31 (Cluster Method). We assume that a surface mesh G of I and a
kernel function k : T' x I' — C are given. Furthermore, an admissibility condition
with an associated expansion system c1>£"), \pg") has to be given. This is done in the
form of a rule for calculating the expansion coefficients k., (b) in (7.18) as well
as the shift coefficients Vo and Youe i (7.29). The chosen order of expansion is

denoted by m.
(I) Preparatory Phase

1. Generate the cluster tree T from G according to Algorithm 7.1.8.
2. Generate the near and far-field P™* and P’ according to the procedure
divide (see Algorithm 7.1.12).

3. Compute and store the shift coefficients vaM zand yfu s Jorall clusters c,0€T.

Compute and store the expansion coefficients k, ,, (b) for all blocks b € prar,
5. Foralli e Tand u € Ly, v € Ry, evaluate the integrals

R

LY = / b (x) @) (x)dsy R = / bi (%) U(Y) (%) dsy
supp b; supp b;

and store them.
6. Foralli € T, {j} € P" ({i}) evaluate the integrals

(Knear)i,j = / b bi (X) k (X7 y) bj (Y) dSdex
supp b;

supp b
and store the near-field matrix in a compressed form (see Remark 7.1.27).
(I1) Matrix-Vector Multiplication

1. Upwards Recursion:

The computation of the coefficients 752") = Rﬁ”’ (u) for all c € T is done with
the program line

Tiemp := T; upward_pass (Ttemp,I, (k?))ven ) ;

where the recursive procedure upward _pass is defined as follows.

procedure upward_pass (Ttemp, c, (ﬁgﬂ) - );
VERm
begin
if c € Leaves then begin ('132”)) = (RE”)) iTtemp:=Ttemp\ {c} ;end
VERm VERm
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else for all ¢ € X (c) do begin
if (ﬁg’)) ) is not yet computed then begin
VER

m

upward_pass (Ttemp,g, (ﬁgﬂ)ﬁdz ) : Tremp = Ttemp\ {C};
end; )
forallv € R,, do RY := Yser, ¥Es RY;
end;
end;

2. Evaluation of the Cluster—Cluster Coupling:

For the cluster—cluster coupling we use the sum representation in (7.26). The
algorithmic representation is straightforward.

3. Downwards Recursion:

The evaluation of the matrix-vector multiplication is based on the recursion
(7.36) and is achieved with the program line

Tiemp :=T; for all ¢ € T;epmp do downward_pass (T,emp, c, (Egﬂ))Ma ) ;

where the recursive procedure downward _pass is defined as follows. The father

F (c) (see Definition 7.1.4) of a cluster ¢ € T\{Z} is characterized by ¢ €
X (F (c)

procedure downward _pass (T,emp, c, ('EE" )) . );
MELmM

begin
e - () ._ () . — .
if c = 1 then begin (BC ) = (BC ) i Tiemp = Tremp\ {c} end
WEL WWELm
else @
. o . .
if (B F (C))ﬁ,eﬁm is not yet computed then begin
B () .
downward _pass (Ttemp, F(c). (B#(C))aez:m)’
Ttemp = Ttemp\{F (C)};
end; .
forall i € Ly do B := B + > ielm V;ZZ,M,CB%()C)"
end;
end;
4. Approximation of the Matrix-Vector Multiplication:
The evaluation of v := Ku is computed according to
vi= Y (Kua)ijuy+ Y LWBE. (7.38)

{j}ePrear ({i}) WELm
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7.2 Realization of the Subalgorithms

The abstract formulation of the cluster algorithm 7.1.31 will now be concretely for-
mulated for the class of kernel functions from Assumption 7.1.1. We will consider
the algorithmic realization of the Cebygev interpolation in detail. This method is
suitable for the cluster approximation of a large class of kernel functions. It is also
easy to implement, as we do not use any analytic properties of the specific ker-
nel functions. Therefore, in order to modify the approximation for a specific kernel
function, only the global kernel function has to be provided as a subroutine in the
computer program. If in Assumption 7.1.1 the kernel function k (x,y) is defined as
the derivative of the global kernel function G (X, y), the expansion functions of the
global kernel functions also have to be replaced by their derivatives.

The expansion is based on the éebyéev interpolation of the kernel function on
pairs of axiparallel cubes Q1 x Q, € R3 x R3 and thus is six-dimensional.

For some kernel functions certain specific expansions may be more efficient.
For example, the multipole expansion of the fundamental solution of the Laplace
problem is only four-dimensional. Four-dimensional expansions can also be derived
for the fundamental solution of the Helmholtz equation. For details we refer to [77,
78,111,194].

7.2.1 Algorithmic Realization of the CebySev Approximation

The essential steps for the algorithmic realization of the cluster approximation
by means of CebySev interpolation consist in the computation of the expansion
coefficients, the basis far-field coefficients and the shift coefficients.

Computation of the Expansion Coefficients

The efficient and stable evaluation of the Cebysev interpolation is first defined for
the one-dimensional case. Let I'; be a real interval, f € C° (I'y) and let (£€ ””)):.nzl
be the Cebyéev interpolation nodes scaled to I';. The index m is omitted if the order
of expansion is clear from the context. We use the Lagrange representation of the
interpolation polynomial

S ()= FLD (x) (7.39)

i=1

with f; == f (E(i)) and L as in Definition 7.1.14. The Lagrange functions L®
and coefficients f; depend on the interval I’y and we write L@, fo.,i to make this
dependency evident.

In the next step this algorithm is generalized so that it applies to the global kernel
function G : Q¢ x Qg — C with b := (¢, 0) € P7% . We set Q. =: 11 X (5 X (3
and Qs := A1 X A3 X A3 with bounded intervals ¢z C R and Ay C R, k = 1,2, 3.
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This leads to

G Y~ Gn(xy) = Y (b)) L x) L (y) (7.40)
WvETm

with J, as in (7.10), the expansion coefficients k,, (b) := G (%’(C’”), S(“"’)) and
L) (x) := JAGEDY (x1) (2512) (x2) L.(3:143) (x3).

We assume that the kernel function k (x, y) of the boundary integral equation is
the global kernel function or a suitable derivative of it:

k(X,y) = DIDZG (X7y)

with derivatives D; (with respect to x) and D, (with respect to y) of order at most 1.
We obtain the approximation of the kernel function by applying D, D, to the
Cebyéev interpolation of the global kernel function. From an algorithmic point of
view the question arises how to compute the coefficients in the derivative of the
Lagrange representation. As an approximation we use [see (7.40)]

D1D:G (x,y) ~ D1DyGp (x.y) = Y Ky (b) D1 LW (x) DLLEOY (y).
WVETm

This means that the expansion coefficients of the kernel function coincide with those
of the global kernel function. Therefore the expansion functions are the derivatives
of the original expansion functions.

Computation of the Shift Coefficients

By integrating the expansion coefficients D1 L"), D, L") over T, we define the
far-field coefficients for the algorithms upward and downward_pass (see Algo-
rithm 7.1.31). We need the basis expansion coefficients RS (b;), L (b;) for the
initialization of the recursion. We need the shift coefficients yiv,c and Vf,v,c to
evaluate the recursion step.

We begin with the algorithm to compute the shift coefficients and thus begin
with the one-dimensional expansion functions LD (see Definition 7.1.14) on an
interval T'. Let & € X (¢) be a son of ¢ in the cluster tree. The Cebysev nodes with

respect to ¢ are denoted by (£©/ ));.":1. Then we have on I'z

LD

i
L= ael ) witha g = LD (é(g’j))'
¢ j=1
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In the following we will present an algorithm to compute the one-dimensional
shift coefficients. We use the representation

m "', i ,k
L) (5@D) = 1—[5(”) — £
g(c,i) _ g(c,k)

k=1
k#i

and for 1 < j < m define the numbers

wj = kl_[ (g;(E,j) _ g(c,k)) and B = kl_[ (E(C’j) _ g(c,k)) . (7.41)
=1 =1
k#j

The shift coefficients L") (£/)) can be computed with these quantities as
given by

w; . ~ .
; i — . if £ £ gle)
aiji = 1.0 (S(C’/)) — (E(C,]) _ g(c,z)) Bi (7.42)
1 otherwise.

We will now consider the multi-dimensional case. Let ¢ be a cluster and
(L(””‘))M T the set of the associated Lagrange functions. Let ¢ € X (¢) be a son
of ¢ in the cluster tree with a minimal axiparallel box Qz = 1 X 2 X t3. Owing to
the uniqueness of the interpolation the restriction of the expansion functions L (€
to the geometric cluster 'z has the representation

L) — L€V
T, Z Yuw,é
VETm
with the shift coefficients
Yuw,e *= Aui,wy i1 Qup,va,in,us,03,03, (7.43)

By virtue of the linearity of the differentiation we have

DZL(C,M)

o= D YuweDal Y

¢ veTm

with the same shift coefficients as for the original functions L*). This yields the
definition

Vv = Vieve = Yuwi- (7.44)
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Computing the Basis Far-Field Coefficients

In the next step we will present a method to compute the basis far-field coefficients.
For this we have to evaluate integrals of the form

/ bi (x) D1 L") (x)dsyx and / bi (x) D, L@V (x) dsy. (7.45)
T T

If the expansion functions are polynomial on every panel T and the mesh G con-
sists of plane panels, the integrals can be evaluated exactly (cf. [112, 117, 157]).
We can then derive recursion formulas by means of integration by parts. However,
we recommend using Gaussian quadrature because of its increased stability, simple
implementation and flexibility, which also allows for the efficient approximation of
general (analytic) expansion functions and curved panels 7. Note that for plane tri-
angles and polynomial expansion functions Gaussian quadrature already yields the
exact integral value with relatively few interpolation nodes.

Example 7.2.1. Let t be a plane triangle with vertices A, B, C € R3. Let the expan-

sion function q>§”’ (X) be a polynomial of degree v; with respect to the variables x;
and let the basis function b; be of degree p. Then we have

1 r& 1 p1
[ bi (%) ) (x) dsy = /0 [O ¢ (6) dErd = [0 [0 tq (11 t112) dtydts

(7.46)
with

q® =21t B ®) (¥ o) ) and 1) =A+[B-A C—BE,

where the basis function B; (&) on the reference element is a polynomial of degree
p. Therefore q is a polynomial of total degree |v| + p and the integrand in the
integral on the right-hand side of (7.46) is a polynomial of degree |v| + p + 1 in 11
and |v| + p in tp. Let n be the smallest integer such that

2n—1>|+p+1 (7.47)

and let (a)k,n, Ek’")zzl be the scaled weights and interpolation nodes on the interval
(0, 1) of the associated Gaussian quadrature formula. If we apply the tensor version
of this Gaussian quadrature on the right-hand side of (7.46) we obtain

n
/b,- x) O () dsy =2t Y Okn@enbknBi (Ekn- Eenben) P (Exen)
t k=1
(7.48)
with the transformed Gaussian points &k ¢, ‘= Xz (Sk,, gk,,ge,,)
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Remark 7.2.2. For a curved triangle the transformation y, : T — T is non-linear.
In this case the integrand in (7.45) on the reference element is, in general, not
a polynomial. Gaussian quadrature should again be used for the approximation.
The quadrature order n with respect to each coordinate direction should be chosen
according to (7.47).

Computing the basis far-field coefficients requires an efficient method to evaluate
the expansion functions D L€*) and D, L") at the quadrature points.

If either D1 or D, represents the identity, L., is evaluated according to the
recursion (7.42).

In the following let D; := (w (x), V) for a vector w (x) = (wg (X))i:1 e C3.
The minimal axiparallel cuboid for a cluster ¢ is denoted by Q. = t; X5 x (3. Then
we have

DyLE (x) = (w (x) . V) L€ (x)

3 3
=Y we ) | [TL4" (xo) | 06 LH (x) . (7.49)
k=1 (=1
L#k

Therefore we need an efficient algorithm to evaluate the derivative of the one-
. m
dimensional Lagrange functions ((L(’)), ({)) v We distinguish between two
=
cases:

1. Let¢ ¢ {S(i) 1< §m}.Thenf0r1 < i < m we have
@Y 0 (N~
(L) ©=L2OF —r

j=1

J#i

2. Let§=§(k) foral <k <m.Thenforl <i < m we have

m 1 .
L® ©) ;m i =k,

(L("))' ©) = =i (7.50)
. 1 .
LD (@) FO ;@ i #k,
where o)
~0) i T $—8Y
LD @) = ]_[ g0 (7.51)
j=1
J#ik

denotes the Lagrange polynomial for the interpolation node €9 i £ k, of order
m — 2 for the reduced set of interpolation nodes {£() : 1 <i <m}\ {¢®}.
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In the following we will present the algorithm to evaluate (7.49). Let ¢ € T and
let Q. = 11 X tp x 13 be the associated cluster box. The CebySev nodes in Q. are

3
denoted by £ = (5,8”‘)) ke Tm.

k

Algorithm 7.2.3. The subroutine evaluate _D L. () generates the evaluation of
the Lagrange polynomials (D1 L(C’”))vejm ata point { = (Z,-)I-le.

procedure evaluate DL, ({) ;
begin
Jork .= 1to 3 do begin

m
Wk = l_[ (Ck - 518)) ;
i=1
for j :==1to m do begin
m

) ._ ) @Y.
g =1 (" -&")
i
i#]
Wi , i
0 T ION a0 ik # 5;?),
LY = (% —g) Bt
1 otherwise
end;
ife, ¢ {g,g") l<i< m} then
Jor j .= 1to m do begin
m
. 1 . L
A]((]) = Z : (DL)I(cj) = Ll(cj)ll(cj);

@
i—16—&
7]

end;
else begin '
choose i with § = E(’);
m
@ ._ L @) ._ ()50
W= i (DL =LA
=15k — &
for j e{l....mi\tiydo (DL =T/ (6 - &)
(see Remark 7.2.4)
end;
end;
forall u € J,, do

3 3

DiLR () = > wi (O (DL T]Ly:
k=1 (=1

L#k

end;
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Remark 7.2.4. (a) Evaluating the quantities Zk, j defined in (7.51) is realized from
an algorithmic point of view in the same way as for the Lagrange polynomials.
For the sake of clarity this step was not explicitly formulated in Algorithm 7.2.3.

(b) The query { ¢ {S,g) 1<i< m} in Algorithm 7.2.3 is numerically unstable

because of roundoff errors. If {i coincides with an interpolation node & ]Ei) up to
machine accuracy, the second, numerically more stable case in (7.50) should
be chosen.

7.2.2 Expansion with Variable Order

By imposing moderate conditions on the surface mesh and the integral operator it
can be shown that the complexity of the cluster method is proportional to (f P) xm*,
where m denotes the order of expansion, A ~ 4 — 7 and § P denotes the number of
blocks in the decomposition P. It is shown in Sect. 7.3 that the order of expansion
m should be chosen proportional to log N to maintain the order of convergence of
the overall discretization. For the number of blocks in P the estimate fP < CN
can be shown for shape-regular and quasi-uniform surface meshes. This yields the

asymptotic complexity bound O (N log)t N ) for the cluster method on trees with

O (N) leaves for some A > 0,as N — o0o. The logarithmic terms do have a negative
impact on the computational complexity for large, practical applications and are
also the reason that the breakeven point (compared to the standard matrix-oriented
representation) is quite large and, typically, lies between N ~ 103 to 2 x 10%. In this
section we will explain briefly how this logarithmic term can be avoided without
any additional algorithmic cost for certain classes of boundary integral operators.
A detailed description of the cluster method with variable order can be found in
[26,199].

First we will combine clusters with the same level within a cluster tree to a cluster
level by Ty := {Z} and recursively for £ > 0 by

T¢ :={c € T : father(c) € Ty—1}. (7.52)

The maximal cluster level is denoted by £,,,x. The level of a cluster ¢ € Ty is defined
by level (¢) := £.

The following assumptions serve to simplify the representation and can be
generalized.

Assumption 7.2.5. (i) The cluster tree is balanced: Vo € Leaves: 0 € Ty, _ .
(ii) All blocks b = (c,0) € P consist of clusters of the same level: ¢,o € Ty for
a0 <€ < Ly

The level hierarchy of the clusters is inherited by the blocks b = (¢,0) € P as
given by
level (b) := level (¢), (7.53)
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and the sets Py contain all the blocks of the level £. The cluster method with variable
expansion order takes advantage of the fact that a high expansion order is only
necessary on large blocks b € Py (with a small index £). These levels, however,
only contain few blocks. Conversely, it can be shown under suitable conditions on
the boundary integral operator that on small blocks b € Py (i.e., £ close to £yax) an
expansion order m = O (1) is sufficient for the approximation and that the required
precision is achieved through the small size of the blocks. For example, we have for
the number of small blocks fPy,  ~ CN.

For the parameters o, B > 0 we define the distribution function for the expansion
order my on the blocks b € Py by

mg = [a (bmx — ) + BT, (7.54)

where [x] denotes the smallest integer y such that y > x.

The formal changes to the cluster algorithm with variable order are marginal
compared to the original version. We summarize them below. We use the algorithmic
description from Sect. 7.1.4.4 to indicate the changes:

1. In the procedures generate_cluster_tree and divide every cluster and block is
recursively assigned its appropriate level.

2. The definition of the shift coefficients y.; - and yX ; - for ¢, € T remains
unchanged. However, the index sets are reduced: v € Ly, ,, V € Ly,
“ € Rmy_y» L € Rm,. We have a similar result for the expansion coefficients
Ku,v (b), which, forb € P far n Py, only have to be computed and stored for the
indices (i, v) € tm,.

3. The basis far-field coefficients Lg?, Rg’; have to be computed for the indices
W€ L, [see (7.54)] and v € Ry g -

4. In the procedure upward_pass, for ¢ € T the expressions v € R,, have to be
replaced by v € Ry, and the expressions UV € Ry, by b € Ry,
In the evaluation of the cluster—cluster coupling the expansion order m has to be
replaced by my for b € Py.
In the procedure downward_pass, for all ¢ € T the expressions i € L, have
to be replaced by i € L, and the expressions i € Ly, by i € Ly, .
In (7.38), m has to be replaced by mg;.

Remark 7.2.6. Modification (2) implies that the expansion functions @, W on Ty,

£ < Lmax, are approximated by means of the expansion functions on Ty, .
We will illustrate the reduction in complexity by using a uniform mesh with
N = 4t 4P, = 4L,
The number of all expansion coefficients «, , (b) is a measure for the complexity

of the method. For the cluster method with variable order it grows linearly with the
dimension of the problem
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Limax Limax

D otPex (m)t =) 4 o (bnax — ) + 1

=0 =0
emax OO
SNY 4@+ B <@+ B NY 4T =G+ BN
=0 =0

Proposition 7.2.7. The cluster method with variable expansion order (7.54)
requires a storage capacity of O (N) real numbers. The evaluation of a matrix-
vector multiplication requires O (N) arithmetic operations.

A detailed study of this approach can be found in [26, 199].

7.3 Error Analysis for the Cluster Method

The error of the cluster method approximation originates when the kernel function is
replaced by the kernel expansion on an admissible pair of clusters. In this section we
will estimate this local error and analyze its influence on the overall discretization.
The global error estimate will be based on the abstract assumption given in 7.1.23.
We will show in the next section that the Ceby3ev interpolation satisfies this assump-
tion in particular for the global kernel function G (x, y) of the differential operator
L as well as for the kernel functions that are derived from it.

7.3.1 Local Error Estimates

In this section we will analyze the error for the approximation of general kernel
functions by Cebyéev interpolation. Error estimates for the Taylor and multipole
expansions for the Laplace and Helmholtz problem can be found in, for example,
[110,111,122,125,194,199].

7.3.1.1 Local Error Estimates for the Ceby3ev Interpolation

We begin with error estimates for the three-dimensional Cebysev interpolation of a
function f : [-1, 1] — C and transfer this to general axiparallel cuboids by means
of an affine pullback. Error estimates with respect to the L°-norm for functions
f : Q1 x Qz — C on axiparallel cuboids Q1, Q5 can be obtained by means of
a tensor argument. Since, in general, the kernel function is defined as the derivative
of the global kernel function, we will also derive error estimates with respect to the
W 1-%_norm at the end of this section.

First we will summarize some of the properties of CebySev polynomials. We
refer to [192] for the proofs. The one-dimensional Ceby$ev polynomials are again
denoted by T, [see (7.13)] and their n-th derivative by T,ﬁ"). For the tensorized
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Cebysev polynomials we use the multi-index p € Ng and write T, (x) = ]_[1-3:1
Ty, (x;) [see (7.14)].

Corollary 7.3.1. (a) Forall x € [-1,1] and n,m € Ny

n—1 m2 — 2
‘T,f,") (x)‘ <™ with ™= 1_[ ST (7.55)
i=0

(b) Forallx € [—1,1]?

‘TM (x)—ﬁ(’”) [T,] (x)’ =0 VueNg: max pu; <m-—1,

1<i<3

‘TM(X)—ﬁ)(m)[TM](X)‘§2 Ve Ng : max pu; >m— 1.

1<i<3
Proof. Part (a) follows from [192, Theorem 2.24].
For (b) The first part of the statement is trivial, owing to the uniqueness of the
Cebysev interpolation polynomial. First we prove the second statement for the one-

dimensional case. The univariate Cebyev interpolation can alternatively be written
in the form

m—1 m
m) [y — , _ 1 (i,m) (i,m)
MU= B AT wih .—m;f(s ) 7ic (£)

By using the orthogonality of the Ceby3ev polynomials with respect to the set of
interpolation nodes

, m 2(=1)° if £/ (2m) = s € Zand k = 0,
=T (80 Te(59M) = <10 itk A0and B —sezor ol =5 ez,
i=1 0 otherwise.

for |k| <m and £ € Z (see [192, p.49]) we obtain

™7, = yemTy, (7.56)
with
£—+¢ mod(2m) .
Ve = (1) 2m Nem = £ mod (2m) if mod 2m) < m,
Yem = — (_1)15—1%;:;2(2m) Ne.m := 2m — £ mod (2m) if £ mod (2m) > m,
Yem =0 Ne.m ‘= £ mod (2m) if £mod (2m) = m.
(7.57)

This and part (a) imply that [TT™ (Ty) (x)| < 1 forall x € [-1,1].
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The second part of the corollary follows from the triangle inequality and by
applying the one-dimensional argument to every factor of the tensor 7, (x) =

TM1 ()C]) TMz ()Cz) TM3 (XS)'
O
Remark 7.3.2. The first coefficients t(") in (7.55) are given by

m2 (m? — 1 m?(m?—1) (m> -4
R (3 ) = ( 15)( )

and are monotonically increasing form = 0, 1,2, ... and a fixed n.

Since the complexity of the cluster method strongly depends on the required
polynomial degree m: it is important to derive as accurately as possible an error esti-
mate for the interpolation error. The error representation (7.12) is not suitable for
this. In the same way as we did for numerical quadrature, we will apply the interpo-
lation to functions that can be analytically extended to complex neighborhoods of
the coordinate intervals under consideration.

In the following we will recall the classical derivative free interpolation error esti-
mates for analytic functions, which are due to Davis [81, (4.6.1.11)]. Let 5” cC
again be the closed ellipse with focal points at @ and b, a < b, with the semlma]or
axis @ > (b —a) /2 and the semiminor axis b > 0 (see Sect.5.3.2.2). The sum
of the semi-axes is denoted by p = a + b. For the three-dimensional version we
consider an axiparallel cuboid @, as in Convention 7.1.13. The ellipses 55:,bi,

1 <i < 3, now refer to the coordinate intervals Q ;1,)3 and, once tensorized, yield the
domain ?gh = ®?_1 55’ b, - FOr the cuboid Q, ) we define the index ¢ € {1, 2, 3}

by blzf; = argmin; _ , 3 {b —a; } and denote

Pmin :=p, and L := (b, —a,)/2. (7.58)

In the case b = (1,1,1)T =: 1 and a = —1 we omit the indices a,b for the
quantities £ and Q.

A classical error estimate for éebyéev interpolation of analytic functions can be
found in [81].

Lemma 7.3.3. Letd =3, Q = [1, l]d and let a function f € C°(Q) be given
that can be extended to an analytic function f* on ?” with pj > 1,1 <i < 3.

“ —
Then for the Cebysev interpolation p,, = T1 [ f] the error estimate

d/2

”f - pm”CO(Q) = \/gzd/z_Hpmm (1 - pmm) Mﬂ (f)

holds with
M, (f) = max | f* ().

€EEP
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Proof. We will only sketch the proof, by using the interpolation error estimates for
analytic functions taken from [81]. For this we introduce the inner product

f (2) g (2)

(f g)p /_)Oh l_[ 2|dZ

= ylt-

and the Hilbert space

12 (82,) 1= |+ f is analyticin 2, and |71, = (/. N1}/ < oo},

The fact that this is indeed a Hilbert space is proved in [81, Chap. 9.2, Sect. III] (it is,
in fact, a separable, closed subspace of the Lebesgue space L? (?f’b)). This space
has two properties that are essential for our application: (a) Evaluation at points on
L? (z):,b) is well defined and the associated operator is continuous. More precisely,
there exists a constant C such that

swp |/ @I =Clfl, VS er?(E4,).

0
€&,y

This estimate is essential for the application under consideration, as the interpolation
is based on point evaluations. (b) L2 (?Z b) is a Hilbert space and thus permits the

application of strong tools from functional analysis of Hilbert spaces.
In the following leta = —1 and b = 1.
The scaled CebySev polynomials

dj2 d

~ i 2 A Zop\"1/2
Tu(z):=cuT,(z) with ¢, := (;) 1_[ (piz”’ + p; 2“’) Yu e NS
i=1
(7.59)

—>
define a complete orthonormal system for L2 (5 :,b) with respect to the inner

product (-, -), (see [81]). For an arbitrary, bounded functional £ on L? (?g,b) we
have

[EOI=<NEl NNl (7.60)

where || E||, denotes the operator norm, which satisfies

E (] _

IEl, =
f€L2( )\{0} ”f”p
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owing to the orthonormality of (TM)M end - Let E be the error of the Cebysev
0
interpolation at a pointx € Q, i.e.,

E(f)=f0-T"[f](x).

From E (p) = O forall p € Q;,—1 and Corollary 7.3.1 we have

Yo E( (T = =Y lEM)) = Y ZlEMm))

weNg neNg weNg

neNg =1\ peNg j=1
ltloo=m wizm
d d
<4 2 —2m 2(p;—m)
N DI DI HJ
i=1 MEN‘I
Mz>m ]#1
e 4 d
) 21
=4(2) X | X ™
i=1 peNd j=1

d
2 2l 2 _ _o\—d
< 4(;) P d Z Puin’ =4\ =) P d (1= pin) -
In view of (7.60) we still need to estimate the norm || /| ,. We have

2
fmfm ( ) >
2=, —22L2 _da< | sup £ @] 112,
? / 0 1_1 1 _Z | ZG?’O ?

It follows from 7%/2Ty = 1 and the orthonormality of the system Tu that
LAI2 <79 M2(f). (7.61)

O

Transferring this error estimate to general, axiparallel cuboids can be achieved
by means of an affine transformation. For this let a,b and let Q,1 be as in
Convention 7.1.13 and Q = [—1, 1]>. The transformation

. 3
710 = Ouap: X(ﬁ)z(ai+(bi_ai)x,;1)

i=1
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is affine. The Ceby3ev interpolation nodes on Ja,p can be obtained by transforming
the one-dimensional interpolation nodes £@ to [a;, b;]

Vi e T EW = X(g(ul)’g(uz)’g(lu))’ @;? — {g(m pe Jm}.
Then the Ceby3ev interpolant on Qayp is given by

—_
oo (=3 £ (W)L,
HETm
where the Lagrange functions L* refer to the set of interpolation nodes @;"'l’,).

Theorem 7.3.4. Let d = 3 and Qay be as in Convention 7.1.13. We assume that
the function f € C°(Qayp) can be extended to an analytic function f* on ?la),b

with p; > (bi —a;) /2, 1 < i < 3. Then the Cebysev interpolant p,, = T [f]
satisfies the error estimate

m 2\ —4/2
If = Pmllcogy < Vd2!/2+! (L) (1_( L ) ) M, (f)

Pmin Pmin

with
M, (f):= max |f* (@)

€&,y
and pmin, L as in (7.58).
Proof. Let f € C™*1(Q,p) and let the affine transformation y : Q — Q,p with

0 = (-1, l)d be defined as before. We set f = f o y and denote the Ceby3ev

interpolant of # on Q by py,. Then we have ﬁ)g”:}) [f1= pm o x~! and obtain

f=TG 1= (= bm)ox™

e PP —1EP . A 3
The transformed ellipse £# := ™" &, satisfies p = (2p; / (bi — ai));j=, and we
set

Pmin = min{2p;/ (b; —a;) 11 <i <3}.

Now we can apply the error estimate from the previous theorem and obtain

|7~ Fas 1] g, = [~ oy = 2 Vi (1-522) ™ M5(7)
52d/2+1\/g( L' )m (1_( L' )2)_d/2Mp(f).
Pmin Pmin
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Remark 7.3.5. Since pmin > L, it follows from the estimate above that the Cebysev
interpolation converges exponentially with respect to the order m.

The approximation of the kernel function of the boundary integral operator is
based on the (local) approximation of the global kernel function G : Qap X Qca —
C, where Qap, Oca C R3 denote axiparallel cuboids as in Convention 7.1.13. The
Cebyéev interpolant of G of order m is defined by

HE;",Z [c.d] [G] (x,y) := Z G (5(”),5(")) L (x) Lo (v)
W VETm

Y (x,y) € [a,b] X [c,d].

In the following we will transfer the statement from Theorem 7.3.4 to this situa-
tion. Let 9pr(nli?1, LM (or prﬁ, L(Z)) be the constants from (7.58) for the cuboid Q, p

(or Qc.a)- We fix (pmin, L) € {(:Or(nllzw L(l)) , (pr(nzii, L(Z))} by

puin/ L = min {p0 /L0, oD /1P

Theorem 7.3.6. Let Qap, Qc.a be axiparallel cuboids as in Convention 7.1.13. We
assume that the function f € C°®(Qap x Qc.a) can be extended on ?’;}b X ?ffd
with (01); > (bi —a;) /2 and (02); > (di —c¢;) /2, 1 < i < 3. Then the Cebysev

(m)

—_
interpolant py, = H[a b].fe.d] [f] satisfies the error estimate

L m
(0)
ILf = Pmllco,px0ea) < Cpp/L (p , ) Mo, xp, ()

min
with
Mgy (f) 1= max __ |f*(v.w)|
(v,w)e & :L & f%
and 4
C = Va2 32 (1-p72)7.
Proof. Firstletb: =d: = 1anda: = ¢: = —1. We adapt the arguments from
Lemma 7.3.3 to the tensorized case. To this end, we introduce the inner product

\Z W)g(V w)

for analytic functions f, g € ?”1 X ?”2 as well as the Hilbert space

L? (?”1 X ?”2> = { : f is analytic in P x €2 and
1f lprsps = (5 I < 00}
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The statements from the proof of Lemma 7.3.3 can be applied to L? (5 L x & "’2)

analogously. "
The polynomials T, (v, W) := ¢, Ty (v) cv T, (W) with ¢, from (7.59) con-

— —
stitute for v, 4 € Ng a complete orthonormal system for L? (5 PLx & "2) with

respect to the inner product (-, )5, x,,- Let E be the error of Cebysev interpolation
at a point (x,y) € Q x Q,i.e.,

E(f)=/fxy-0" g /1&y.

It follows from E (p) = 0 for all p € Q-1 X Q—1 and the second estimate in
Corollary 7.3.1(b) that

|E(Tuw)| = ‘Tuv(x y) — I—I(mn][ 11] (Tuw) (X’Y)‘

= |7, | 1T, @)1 + [T (7,) 0| [T (1) )] = 2

and thus

YETw) = Y e |E ()]

p,,veN(‘)l u,vENg
- Y GdlEmaf=e Y aa
(1,v)eNE xN¢ (1,v)eNg xN¢
[(sv) oo =m [, oo =m

SEEL T e

uf-q’zm
2 d (r)
21
(r) Y
Xl_[ 1_[ (’OJ)
r=1 j=1
(r,j)#(g.i)

—2v;
<4

%)M oo Y 1) 06)

(1,v)eNg xN¢ /=1

—2d

3 —2m _ A2
4 7[) min (Zd) (1 pmin)
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The norm || /|| 5, xp, 18 estimated in the same way as in (7.61). Thus,

LA, py < T2EME L, ().

The results for the general axiparallel cuboids follow by an affine transformation.
O

The kernel function of the boundary integral operator under consideration is
either the global kernel function or a directional derivative thereof. In the latter case
we define the approximation of the kernel function by the directional derivative of
the approximation of the global kernel function. The corresponding error estimate
can be found in the following two theorems.

Theorem 7.3.7. Let Qap, Qc,a be axiparallel cuboids as in Convention 7.1.13. Let
f € C'(Qapx Qca) and D € { o ’By (1<i < d} We assume that the func-

tion Df can be analytically extended to Sp‘ X szd with (p1); > (bi —a;) /2

and (p2); > (di—ci)/2, 1 < i < 3. Then the Cebysev interpolant pp, =

T (m)

[a.b].[c.d] [f], m = 2, satisfies the error estimate

1) (Pmin/L +1

m—1
1D (f = Pm)llco@upx0ea) = Cpp/L 2omm/ L ) My, xp, (Df).

(7.62)
with
2 d—1/2
C(l) = dC 2d+3/2 L
P ,0 _1
and ¢, from (7.63).

Corollary 7.3.8. The constant C )

Pmin

(108 pmin) > while for pmin — 1 it grows as (Pmin — 1)_d_2.

tends to zero for pyin — 00 at the rate

For the proof of Theorem 7.3.7 we need a lemma.
Lemma 7.3.9. Form € Noand p > 1
o] 2m
~ 1
5 poner <2, (221)
k=m P
with 4
~ 2 4p?

C,:= 7.63
" \em ()] Gor o (769

Proof. An elementary analysis yields
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From this we obtain

4
0o 00 2k 2
= eln (%) =\ 2 2p

O

Proof of Theorem 7.3.7. We first consider the non-tensorized, one-dimensional case
d =1and f: C!([-1,1],C). We set g := f’ with the analytic extension g* :
&P — C. The approximation of g can be represented by g, := (H("’) g(_l)), with
g (x) = f_xl g (s) ds. The error functional E is defined in this case by

E(g) :=(g—8gm) (Xy).

The norm || E||, again has to be computed and we use the previously developed
method. The definition of g, implies that E (p) = 0 for all p € Py,—>.

~ /
To estimate |E (T k)| we need to find an upper bound for (H(’") Tk(_l)) and use
(see [192, Exercise 1.1.4])

1/(2s) s#0

Tk(—l) = Br4kTks1 + Bi—ikTie—1 +ox  with By := { 0 otherwise

and a constant og. With (7.56) and y; ,,, and 1 5, from (7.57) we obtain
H(m)Tk(—l) = )’k+1,ml31+ank+1.m + Vk—l,m,Bl—ank_lm + ok
and by differentiation
(m) - (=1) ! ’ ’
(H T, ) = Yk+1mPrak Ty, + Ve—tmBr—x Ty, -
Corollary 7.3.1 implies for all x € [—1, 1] and t,il) as in (7.55) that
|T,é (x)| < k2.
In all we have shown that

(mn) o

< Brak sy + Bk My < (m — 1)

The norm of E can therefore be estimated in the same way as in the proof of
Theorem 7.3.3. With Lemma 7.3.9 we obtain
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o0 " ’ o0 00 )
NIETI = Y GIE@P= Y G (K +m-1?)
k=0 k=m—1 k=m—1
> © 2m—2
8 8~ (p+1
<4 254 < ~2kp4 - O F .
= Z Ck p Z P =2\
k=m—1 k=m—1
Now let b:=d:=1anda: = c¢: = —1. Without loss of generality we choose

D = a . Let E be the derivative D of the error of the Cebygev interpolant at one
point (x, y) eQdxQ

E(f)=Df xy) =DM 1y [/ oy,

where D is an antiderivative of f with respect to the first variable. Let Q,,_;
be the set of all polynomials p € Q,—1 with (x;p) € Qp—1. It follows from
E(p) = Oforall p € Q,,_; X Qpn_1 combined with the previous results for
M1 = m — 1 that we have the estimate

- _
|E (Tun)| = | DT 9 = DHM 1 (T57) o)

- _ -
= DT @[T @] + | DT (170) @ [T (1) )] = 2083,
/
For ;1 <m — 1 we use (Tm — H(m)T,ETI)> = 0 and also obtain

B (Tu)| = |75, 00 [(TF =T 00)) To )
~(IMF=n 7, (x))

I T ()| < i+ 1) = 243,

We denote the Kronecker symbol by §(4.).- /) and for t € N& we set uy = pu+e;
withe; = (1,0,0,...,0)T. Then we have

S UETun) = Y 22 |E (Tuy))

p,,veN(‘)l u,vENg
c2? 2 22,4
= SIETw)[ =4 Y chelud
d d
(1,v)eNE xNg (,v)eNg xN¢

[(hgv)| o zm [(1420) ] g0 zm
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2V Gy OV (@) 2"
S(2) XY T () ()
g=1i=1 (M ;;@)eNg xNg

1P +8.0y.1.1y2m
"

—_

QA

J
(r,7)#(, i)
4 (
(q) .
i +8q.iy.a,n=m

2 d 21"
Q) Y
x l_[ H (p,- )
2d 2 .
ol (D@
YIS E )
Lem.7.39 ~ 2 2d 2 2d-1 'min 1 am=2
= 8Cpmind (_) ( 2’Omm ) (p i ) :
b4 Proin — 1 2 Pmin

r= j=1
q=1 l_l(M(l),M(z))ENdXNg
The norm || Df || 5, xp, 1s estimated in the same way as in (7.61). Thus
2 2d 142
1f 15y xpy = 77 Mg xp, (DS).
In all we have shown that

pmin"f‘l m-l

ID(7 = Pl rio-sn = Cou () Mppsgs (D).

The result for general axiparallel cuboids can again be achieved by an affine
transformation. We again first consider the one-dimensional, non-tensorized case
that g : [a, b] — C and note that

d
I P

Mgt “) (x () = ( e “) (£) =2 &m (£)

with g := g o x. It follows that

g — gmllLootapy = 118 — &mllLoo(—1,1) -

Now we can apply the error estimates for the unit interval.
From the previous results we deduce for the tensorized case

=~ ,Omin/L + 1 m=1 —_
1D (f = Pm)llco@upx0ea) = € omin/L (W M, xp, (Df) :

The assertion finally follows by means of a transform to the original coordinates

Mpip (DF ) = Mpysepn (DF ).
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In the following theorem we consider the error of the approximation of the
second derivative of the global kernel function.

Theorem 7.3.10. Let Qap, Qca be axiparallel cuboids as in Convention 7.1.13.
LetfeCz(Qabecd)anlee{ 1<l<d} Dze{ 1<l<d}

We assume that the function D1 D, f can be extended to ?:b X ?gzd with (p1); >

(bi —a;) /2 and (p2); > (di —¢;) /2, 1 < i < 3. Then the CebySev interpolant

—>
Pm = Hg"g] fe.d] [f], m = 2, satisfies the error estimate

Pmin/L +1 m-l

11027 = polesiounen < 57 (BT ) Moves (1221

with
d—1

C(2) _C \/_2d+3/2( 2 )
0% —1

The proof is completely analogous to that of the previous theorem and will
therefore not be detailed.

For the error analysis of the cluster method we apply the Cebygev interpolation
to the global kernel function for separated cluster boxes O, Q». To be able to use
the estimate for the interpolation error we need to estimate the modulus M), x,, for
the (derivative of the) global kernel function.

Here we will restrict ourselves to the fundamental solution G : R3\ {0} — C

G 1 eb:z)a—Allzlls 52 5
z) = , =c+|b (7.64)
O = xdas s Pl
from (3.3) and the kernel functions derived from it
ki(x,y) =G (x—y), ka (X,y) = 714G (x—y),
(7.65)

k3 (x,y) = 71xG X—Yy), ka(X,y) = y1xV1yG(x—Y)

with the conormal derivative y; and the modified conormal derivative y; [see
(2.103), (2.107)]. Let n be as in Definition 7.1.11.

Lemma 7.3.11. There exist constants Cy, Cy that depend only on the coefficients
A, b, ¢ in (7.64) and T with the following properties.
Let (0,5) € P7% and Qy =: Qap, Qs =: Qc.a. With

= Pl 2 ) = Gl (1 2
PLi - ) Cl’] P2, - 7 Cln
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—
forl <i <3, 04 dyG (x—y), | + v| < 2, can be analytically extended to & Z"b X

?f,zd and satisfies the estimate

1
CZ ) +lpn+v|

sup [09G (x—y)| = (m

(x,y)e?f})x?iﬁ
Proof. Let (0,5) € P/ be an admissible far-field block with associated clus-

ter boxes Qs =: Qap, Os =: Qcqa. The singular behavior of the function
ox dy G (x —y) is characterized by the function

1100 x Qs >R galxy) = x—y|™
which we will consider first. It follows from the admissibility condition
ndist (Qgs, Os) > max {diam Q, diam Q,} (7.66)

that g, can be extended with respect to every variable to ellipses 55? I’) or 55‘2";,
1-°Y1 1%
1 <i < 3, where

|bi — a; ( 1 dist(Qo, Qs)) bi —ail ( 2 )
i = 1+ 2 1+_ ’
P, 2 33 |bi —ail /2 2 Cn

C :=33and P2, > @ (1 + 2/ (Cn)). The function g, can be estimated on
these ellipses by

c A

su «9= (35005

p gr X, y) = - .
(x,y)e?ﬁll'b]x?fgd] dist (QO, Qs)

This result can be directly transferred to the function ||x — y||1:)t for the met-
ric induced by A. This is achieved by replacing the constant C by a constant that
depends on A.

For the fundamental solution G (x — y) or its derivatives 9% dyG (x —y) the size
of the analyticity ellipses remains unchanged. For the estimate of the function on
the analyticity ellipses we obtain

C )1+|M+v|

#5669 (g g

=01 )
x,y)e & a,hX?c.d

where C depends on the coefficients A, b, ¢ of the differential operator and on I'.
O
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By combining Lemma 7.3.11 and Theorems 7.3.6, 7.3.7 and 7.3.10 we obtain the
estimates for the blockwise approximations:

~ — ~ - —>
kry) =T e aG&x—y),  ky) =Ty a6 x=y),

~ — ~ L =
ks (x.y) = yix oo G K= ¥) . ks (x.¥) = y1xP1y T o) oG =)
(7.67)
of the kernel functions from (7.65) on admissible far-field blocks (o,s) € P/er
with associated cluster boxes Qs =: Qap and Qs =: Qcq.

Theorem 7.3.12. There exist a sufficiently small no € (0,1) and constants
0 <cy <1, Cy > 0 that depend only on the coefficients A, b, ¢ and T" with the
following properties.

For all 0 < 1 < no in Definition 7.1.11 the approximations (7.67) of the kernel
functions from (7.65) satisfy on all admissible far-field blocks (o,s) € P74 the
error estimate

ooy S CocT (Wist(Qa. 05) ™1
a,b c.d

[ -]
with
vi:=0, vo:=v3:=1 and v4:=2.
Proof. Lemma 7.3.11 combined with Definition (7.58) yields

2
Pmin/L =1+ —. (7.68)
Cn

If we insert this into the error estimate from Theorem 7.3.6 we obtain

- Cnp \" 1
ki—k <C
H L c0(Qapx0ea) = ‘(z+cn) dist (O, O5)

with a constant C; that depends only on I', 1o and the coefficients A, b, c.
For the first derivatives D € {d/dx;,d/dy; : 1 <i <3} we combine Theo-
rem 7.3.7 with (7.68), which gives us

) 1+Cp\"! 1 ’
2o =€ () (st2an)

with a constant C, that again depends only on I', 59 and the coefficients A, b, c. If
we choose ¢ := % and Cy := C,/c; we obtain the asserted estimate.
For the mixed derivatives D1 € {d3/0dx; : 1 <i <3} and D, € {3/dy; : 1 <

i < 3} we use Theorem 7.3.10 and obtain

(76)" (waas)
<G . :
CO(QaAthCAd) 2 + Cn dISt (QU7 QS)

0011 4)




448 7 Cluster Methods

The derivatives y;1, y; can be written as a linear combination of the above-
mentioned differential operators with L*°-coefficients. This yields the estimates
from the assertion for k; — k;, j = 2,3, 4. O

Remark 7.3.13. The error estimates prove the exponential convergence of the ker-
nel approximations with respect to the expansion order m. Note that by employing
the classical error estimate

Hu— H(m)u)

coqery = 1 em) 188 e =vicog-1n)

with the Lebesgue constant

- sup (IMutl| co—1,17) / el co—1,13))
ueCO([—1,1D\{0}

and the estimate ¢, < Cm we would obtain the far more pessimistic estimate
A 6 .—m (q; -1
Hkl " H < ComSeT™ (dist (0, 05)) .

Since the previous, derivative-free error estimates due to [81] take advantage of the
6

analyticity of the kernel function, we were able to avoid the factor m°.
Remark 7.3.14. The size of the constants Cy and cy for special kernel functions
can be found, for example, in [125] and [122]. For the Taylor approximation of the
Sfundamental solution of the Laplace operator we obtain Co = 1 and ¢y = 1.

Remark 7.3.15. The explicit dependency with respect to the coefficients A, b, c in
the fundamental solution has to be analyzed from case to case. For the Helmholtz
problem with a large wave number ¢ << —1 the quantity My, xp, (k1) grows
exponentially with respect to \/H and the expansion order m has to be chosen

proportional to \/|c|.

7.3.2 Global Error Estimates

Replacing the kernel function locally by the cluster approximation defines an
approximation b (-, -) of the sesquilinear form b (-, -). We have derived local error
estimates in Sect.7.3.1.1 for the Ceby3ev interpolation. In this section we will use
the abstract assumption 7.1.23 imposed on the local accuracy of the approximation
of the kernel function. From this we will use the Strang lemma to derive an estimate
for the error b (-,-) — b (-, -).
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7.3.2.1 L2-Estimate for the Clustering Error Without Integration by Parts

We consider the class of kernel functions from Assumption 7.1.1 and use the admis-
sibility condition from Definition 7.1.11 with a fixed n € (0,1). Leth : § xS — C
be the sesquilinear form for the integral operator K and let b be the approximation
that is defined by the cluster representation.

First we will introduce some surface and mesh dependent constants that will be
needed for the error estimates.

Assumption 7.3.16, which is related to the geometry of the surface I', excludes
strongly folded surfaces. For 0 < r < R < diam T and x € I" we define the annular
domain Ag , (x) by

Agy(x):={yeR?:r <|x—y| < R}.

Assumption 7.3.16. There exist constants Cr,Dr > 0 such that the two-
dimensional surface measure of the intersection I'g , (X) := I' N AR, (X) satisfies
the estimate

T, (x)| < Cr (R*—r?).

forallx e T'and0) <r < R < Dr.

Assumption 7.3.16 implies the estimate
lw| < Cr (diam w)?
for all subsets w C I" with the (Euclidean) diameter diam w.

For a given surface mesh G the constant g¢g indicates the quasi-uniformity of
the mesh (see Definition 4.1.13) and kg describes the shape-regularity of the ele-
ments (see Definition 4.1.12). The minimal constant in the inverse estimate (see
Corollary 4.4.6)

el ooy < Ch ! lull L2y Vieg, Vues (7.69)

is denoted by Cjyy. For s > 0 we need the auxiliary function Cs : R~og — R

1 0<s<2,
Cs(h):=h"241+|logh| s=2, (7.70)
h%=s s> 2.

Convention 7.3.17. In general, we will assume for the following theorems that
either Assumption 4.3.17 or Assumption 4.3.18 is satisfied. The constants in the
following theorems usually depend on the polynomial degree in S gp and on the mesh
G via the constants kg, qg, Ciny. In the case of curved surfaces they also depend
on the derivatives of the global transformations y, y~', even if this is not explicitly
stated.
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Theorem 7.3.18. Let Assumption 7.1.23 be satisfied with s > 0 and y € 10, 1[ and
let Assumption 7.3.16 hold. For the cluster approximation b of the sesquilinear form
b of the integral operator K the following holds with the notation introduced above:

bu,v)—b(uv)| <Ce llullo.r IVllo.r forallu,ve S

with

e:=y"Cs (h) (7.71)
and a constant C that depends only on s, , I, the constants from Assumption 7.3.16
and the parameters described in Convention 7.3.17.

Proof. We use the notation from Assumption 7.1.23 and Definition 7.1.11 and by
applying (7.19) we thus obtain the estimate

|E (u,v)] == )b(u,v) —E(M,v)‘ [ v (®)] [k (x,y)
b= (ca)eP/“’ TexTo

k3" (x,y>] [ (¥)| sy
[
T

<C
4 xr, dist’ (c,0)

——————dsydsg
b=(c, o)eP Sar

For all cluster pairs (c,0) € P/ the admissibility condition implies the
estimate

-1

dist (c,0) = |x —y|| = ! max {diam ¢, diam o} > (ggn) "' h

(x,y)e Q( Qo
with mesh width & = h (G). The geometric far-field blocks are thus contained in
(T x 1) = {xyeT: Ix=yl = (ggn " hf.
Since

dist (¢,0) = dist(Q¢, Q¢) > ||x —y|| — diam Q. — diam Q,
> |x —y| — 2ndist(c, o)

for all (x,y) € Q. x Qs we obtain the estimate

dist (c,0) > Ix -yl -

14 2n

Therefore s > 0 yields the estimate

1
E )] < C (14 20° 1™ ] ooy V] oo / L dsds,.
Loe@ BRL=M foppyrar x — y|° '



7.3 Error Analysis for the Cluster Method 451

In Corollary 7.3.19 we show that

1
—— dsydsy < csh*Cy (h)
/;rxr)f“’ Ix—yl* Y ’ '

with Cs (h) as in (7.70) and a constant ¢, that depends only on s, I" and 7.
For a boundary element function u there exists a panel t € G such that

leell Looqry = Nutll oo @y < Cimvhz "l 2ry < Cimggh™ llull L2ry -
Combining this we obtain
|E (u,v)] < CCs (h) y™ llull 20y IVl L2(r)

with
C = csCZng (1+2n)°.

Corollary 7.3.19. Let Assumption 7.3.16 be satisfied. Then we have

1
— _ds.ds, < ch?C, (h
/@Xr)m [y sy = eshTCs ()

with Cg (h) as in (7.70) and a constant cy that depends only on s, T and n as well
as the constants from Assumption 7.3.16.

Proof. (a) Let 0 < s < 2 For this case the statement follows from the fact that
|x —y||”* is improperly integrable:

1 1
—dsyds 5/ ——dsydsy < 00.
/(rxr)f‘” Ix—=yI* T Jeer Ix =yt

(b) Let s > 2 and Cr, Dr as in Assumption 7.3.16.

Weset§ := (qgn)” " handn := [Dr/§], where [a] denotes the smallest integer
larger than or equal to a. Forx € T" weset I; (X) := I' N A +1s,i5 (x), 1 <@ <
n—1,and I'; (x) := ' N AgiamT,n8 (X).

Then with Assumption 7.3.16 we have

A —y||‘~‘dsy—/zfr Ix = y1I~* dsydss

i=1
/ [ I — I~ dsydss
Fn(x)

/Z|r ()] (i8) dsx + D* |T'|?

i=1
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dsx + Dp* T2

n—1 . 2 con2
3 (i + 18— (i8)
—CF[F @s°

i=1

n—1 5.
_ 2i +1 _
= Cr8* 0| Y —— + DF° [T,
i=1
For s = 2 we have

2
L <CrT| (Zlog(n D42+ %) + D2 T2,

Since Dr depends only on T, it follows for a sufficiently large n = [ggnDr/h] or
a sufficiently small /4 that the statement

I <C (1+1logn) < C (1 + |logh)

I -1 2i i :
is satisfied. For s > 2 we have Y /_; 2H < 3% 2Lt < oo, and the assertion

follows from §27* < C h?~5. O

7.3.2.2 L2-Estimates for the Cluster Method with Integration by Parts
The estimate in Corollary 7.3.19 is too pessimistic for hypersingular kernel func-
tions (s = 3) if we regularize by means of integration by parts (see Theorem 3.3.22).
Applying integration by parts to the hypersingular integral operator for the general
elliptic boundary value problem yields the representation

b (u,v) = by (u,v) + b1 (u,v),
where b1 (u, v) contains a kernel function that satisfies

k1 (x,y)| <C|x—y|“ for all x,y € I" almost everywhere

with @ < 1 and where by (u, v) has the form

[F ko (5.3) D1 ] () D2 7] () diyd.

D and D, denote differential operators in the tangent plane of I with an order
equal to or smaller than one, i.e.,

[Diullp2qry < C llullgrqry and  [[Davlp2qry = C Vg1 -
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The kernel function of by is weakly singular
lko (x,y)| < C |Ix —y| " forallx,y € I withx # y.

The cluster method can now be applied separately to each of the sesquilinear forms
by and b; so that Theorem 7.3.18 can be applied with slight modifications. In the
error estimate for the approximation of the bilinear form b4, s in (7.71) has to be
replaced by «. The error estimate for the cluster approximation of by reads:

bo (u,v) — bo (u.v)| < Ce |ull gr(ry IV g1y~ forallu,v e H' (I),

where s = 1 has to be chosen in the definition (7.71) of ¢.

7.3.2.3 Stability and Consistency of the Cluster Method

We assume that the sesquilinear form b : HS (') x H* (I') — C in (5.68) is
continuous, injective and coercive with an s € {—%, 0, %}
For a given right-hand side F € H™* (I') we are seeking u € H* (I') such that

bu,v) =F () Vve H’ ().

The conforming boundary element space S C H® (I') is defined on a surface
mesh of I with a local polynomial degree p € Ny (see Chap.4). The Galerkin
solution ug € S satisfies

b(us,v) = F (v) Vv eS.

Since the influence of the quadrature error was already studied in Chap.5, we
assume in this analysis of the error introduced by the cluster method that the near-
field integrals are computed exactly. Then the cluster method defines a perturbed
sesquilinear form b : S x S — C. This leads to the perturbed Galerkin solution
125 eS .

b(ug,v) = F (v) Vv e S. (7.72)

In this section we will estimate the error u—ug which is introduced by the cluster
method.

We will assume that the right-hand side in (7.72) is computed without any numer-
ical errors, i.e., the components of the vectors F (b;) in the right-hand side of the
linear system of equations are evaluated exactly. If this is not the case the influence
of this additional error can be analyzed as in Sect. 5.3.3.

If the surface is sufficiently smooth and the solution of the problem (5.67) is
sufficiently regular the following asymptotic estimate for the unperturbed Galerkin
discretization error holds (see Sect. 4.3):

1_
lu—us | gsay = ChP*=s lull g o+1(ry -
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In order to achieve this order of convergence for the perturbed approximation as
well, we will use Theorem 4.2.11.

Let s— := min {s, 0} and s+ := max {s, 0}. The stability and consistency condi-
tions (4.151) and (4.153) follow from Theorem 7.3.18 and the inverse estimate, and
they are given by

b u,v) = b )| = CCo ) Y™ = g oy I sy
b @) =B )| = CC )y h ullgsry IV sy
for all u, v € S. Therefore the conditions
C(y"h?-"3%0  and G (h)y"h- < ChPHIS
are sufficient for the stability and consistency of the cluster method. The following

table gives the required orders of expansion for s = {—1/2,0, 1/2}, corresponding
to weakly singular, Cauchy singular, and hypersingular boundary integral equations.

s:—% s=0 s=1/2
n|| (p + 3) [logh| +log (1 + [logh|) logh
m|(p+ 4|12 (p+7/2) |22
llog y| logy

(7.73)

Theorem 7.3.20. Let the conditions from Theorem 7.3.18 be satisfied. Let the
sesquilinear form b : HS (I') x H® (') of the boundary integral operator be contin-
uous, coercive and injective for an s € {—1/2,0,1/2}. Furthermore, let the order
of expansion be chosen as given by Table (7.73). Then the Galerkin solution with
the cluster method converges with the same order as the exact Galerkin solution.

For hypersingular kernel functions the order of expansion refers to the direct
representation. If we apply integration by parts for the purpose of regularization,
the order of singularity is reduced (see Sect. 7.3.2.2). The order of expansion m is
reduced accordingly. We refer to [107] for details.

7.4 The Complexity of the Cluster Method

In this subsection we will show that for all kernel functions k (x,y) which satisfy
Assumption 7.1.23 the cluster method reduces the storage and computing complex-
ity from O (N 2) for the matrix-oriented representation of the Galerkin method to
O (N log“ N). We note that the class of kernel functions that we consider here is
considerably more general than the (47 ||x — y||)_1 -kernel for the Laplace equation.
For this specific kernel, complexity estimates are proved in, e.g., [111].

The estimate consists of two parts. First we will show that, if we impose suitable
conditions on the surface and the surface mesh, the number of blocks in the covering
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is of the order N. Then the algorithmic complexity of the cluster method is estimated
per block and cluster, from which we determine the overall complexity.

7.4.1 Number of Clusters and Blocks

We will estimate the number of clusters and blocks for quasi-uniform meshes and
balanced cluster trees. Details can be found in the following assumption. The level
of a cluster and the maximal number of levels within a cluster tree are defined as in
(7.52).

Assumption 7.4.1. I. Leti € T <= {i} € Leaves.
2. The mesh width h of the mesh G and the maximal number of levels £« in the
cluster tree satisfy
2bmapy > C, (7.74)

with a constant C, that does not depend on h or £ p,x.
3. Every cluster ¢ € T\ Leaves has at least four sons.
4. Every block b = (c,s) € P satisfies level (¢) = level (s) .

Remark 7.4.2. Algorithm 7.1.8 does not necessarily produce cluster trees that sat-
isfy Assumptions 7.4.1.(2) and 7.4.1.(3). This problem can be easily resolved by
using a post-processing algorithm to redefine the set of sons for all clusters o0 € T
with i3 (0) < 4 according to T (0) := Usex (o) Z (5)-

Assumptions 7.4.1.(1) and 7.4.1.(2) simplify the complexity estimates for the
cluster method. We recommend using Algorithm 7.1.8 in an unchanged form for
the numerical computations. An algorithm for the generation of a cluster tree that
satisfies Assumptions 7.4.1(1)—(4) is described in [199].

The constants in the following assumption depend on the polynomial degree of
the boundary element space while we do not track this dependence explicitly.

Assumption 7.4.3. There exist constants ¢, and C), such that

cp = (9) /(D) < Cp.
First we will derive estimates for the number of clusters in the cluster tree.

Lemma 7.4.4. Let N := {7 and let Assumption 7.4.1(1) hold. Then

T < 4N

f— 3 .

Proof. Let T be the set of all clusters with a tree depth of £ € Ny [see (7.52)]
Ty :={c €T :level(c) ={}

We have {7y, = {7 = N and, thus, recursively

1
1Te—1 < ZﬁTl-
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By summing we obtain

Limax 00 4
NY 47<N) 4" = 3N
i=0 i=0

O

In order to estimate the number of blocks in P we use the admissibility condition
and a result concerning the size of the clusters ¢ € Ty. The constant that describes
the quasi-uniformity from Definition 4.1.13 is again denoted by ¢g¢g and the minimal
constant in (7.69) is denoted by Cjy,.

Corollary 7.4.5. Let Assumptions 7.3.16, 7.4.1 and 7.4.3 hold. Let the cluster tree
be generated by the procedure generate_cluster_tree (see Algorithm 7.1.8). Then
foro e Ty

diamo < 2=t diam T + 4h,
ITo| > (qgCiny) > 45mat"1p2, (7.75)

where diam (-) again denotes the Euclidean diameter.

Proof. (i) Let 0 € T\ Leaves be a cluster with cluster box Q4 andlet Q € £ (Qy)
be a congruent sub-cuboid [see (7.4)]. The maximal edge length of O, is denoted
by L. Q is associated with the cluster s = s (Q), which contains all the indices
i € I with Mg, € Q (see Definition 7.1.6). The support of the basis function
corresponding to the degree of freedom i satisfies diam (supp b;) < 2h. Therefore
the maximal edge length of the cluster box Qy;, is bounded from above by 2/. The
union | J; ¢, Qyy is thus contained in a cuboid with the center of mass M, and the
maximal edge length L /2 + 2h. Hence it follows that

1
diams < EL + 2h. (7.76)

Clearly we have for the rootZ € T
diamZ = diam I

With (7.76) we thus conclude for o € Ty by induction that

{—1
diamo <2 ¢diamT + 2h Z 2=t <2t diamT + 4h.
i=0

(i1) By Assumption 7.4.1.(3) every cluster ¢ € T'\ Leaves has at least four sons.
With £ := level (o) it thus follows that

fio > 4tmnt, (1.77)
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Since every panel has at most 4 vertices (for triangles only 3 vertices), ['; contains
at least ffo/4 different panels. We obtain a lower bound for the surface of a panel
with inequality (7.69) by choosing # = 1. This yields

lt| = ||1||%,2(1:) = hi/clﬁv ”1”%,00(1) = (hr/Cinv)2 > (CIQCinv)_z h? vVt eg.
It follows that
ITo| > (ggCiny) > 4bme=t"1p2, (7.78)
a

Corollary 7.4.6. Let the conditions from Corollary 7.4.5 be satisfied. Then there
exists a constant C that depends only on qg, Cin, Cp and diam I' such that

diamo < C27* (7.79)

forallo € Ty.
Proof. Estimate (7.75) with 0 = Z implies that
|F| > (QQCinv)_z 4[max_1h2
and it follows that
h < 2¢gCin2 > diam . (7.80)
Therefore the constant in (7.79) can be chosen as C = (1 + 8¢gCiyy) diamI". O
With this corollary the number of blocks in P can be estimated.

Theorem 7.4.7. Let the assumptions from Corollary 7.4.5 be satisfied. Then
gP <CN,

where C depends only on n, C, Cr, qg, Ciny, Cp and diamI'.

Proof. Let b = (0,s) € P. The construction of the covering P of Z x Z by means
of the procedure divide implies that the father b = (G,5) := father (b) is not
contained in P/?" and that the admissibility condition for b is violated. Therefore
we have

ndist (0,5) < max {diam &, diam§} . (7.81)

It follows from o C & that I'y C I's, and combined with (7.81) we obtain

1
dist (o, 5) < dist (0, 5) + diam o + diam§ < (— + 2) max {diam ¢, diam 5} .
n

We set £ := level (o) = level (s). Corollary 7.4.6 implies the estimate

dist (0,5) < C (1/n+2)27¢. (7.82)
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For all (x,y) € (I'y, I's) we have
|x —y|| <dist(o,s) + diamo + diams,
and it follows from (7.82) that
Ix—yll<CQ/n+2)2 +2027 = ;27"

This estimate means that the subset of I' x I which is covered by the blocks (o, 5) €
Py (more precisely by (I'y x I'y)) is contained in

(M x D)= {xy : Ix—yl = 27} (7.83)
Forx € I" we set
Iy (x) = {y el:|x—y| < clz—‘} .

Assumption 7.3.16 yields
T, (x)| < C47¢

and it follows that
(T xT),| <C|T|47¢ (7.84)

With the help of (7.75) the surface of the block can be estimated by
|(Ts. Ts)| = [T [Ty| = 1671 1/ (g9 Cine))* - (7.85)

This means that the number of elements Py [see (7.53)] is bounded by the quotient
of the right-hand sides in (7.84) and (7.85):

Py < CW;;M' (7.86)
If we use (7.74) and sum over all levels we obtain f{ Py < C»4% and
4P = ei: 8P < Cy %45 < 24“aerl (7.87)
£=0 - £=0 -3 .

If we then choose 0 = 7 and £ = 0 in Estimate (7.77) we obtain the assertion

P <C3(42).
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Keeping in mind (7.26) and (7.38) we still need estimates for the cardinalities of
the sets P47 (¢), ¢ € T, and P™® (c), ¢ € Leaves.

Theorem 7.4.8. Let the conditions from Corollary 7.4.5 be satisfied. Then for all
o € T and c € Leaves

§P7" (o) + §P™ " (c) < C,

where C depends only on 1, C,, Cr, Cp, diamI' and the parameters described in
Convention 7.3.17.

Proof. Leto € Ty and P/9" (o) be defined as in (7.7). It follows from (7.83) that all
clusters s € P/2" (¢') (more precisely, the geometric clusters I's) are contained in

Ty ()= {y el x—y| < clz—‘}.

xels

Let M, be the center of the smallest ball that contains I'; and let r, be its radius.
Clearly we have with Corollary 7.4.6 that

re < diamo < CZ_Z,

and that I'y (o) is contained in a ball B, around M, with radius 27t =
(Cy + C)27¢. The surface measure of the intersection B, N I' can be estimated
with Assumption 7.3.16 according to

|B, NT| < CC247%, (7.88)

Assumption 7.4.1(4) implies P/?" (¢) C Ty and Corollary 7.4.5 gives us that
every cluster s € P/%" (o) satisfies the estimate

ITy| > 4bma=t=1 (n/c)? . (7.89)

The quotient of the right-hand sides in (7.88) and (7.89) constitutes an upper bound
for the number P /4" (o)

3
ﬁpfar (0) < —h24£max
and combined with Assumption 7.4.1(2) we obtain the assertion.

The proof of the estimate for the near-field clusters P (c), ¢ € Leaves, uses
the same arguments as above and is therefore omitted. O
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7.4.2 The Algorithmic Complexity of the Cluster Method

In order to estimate the complexity of the cluster method we will make the following
simplifying assumptions. For a more general discussion we refer to [109].

Assumption 7.4.9. Let Assumptions 7.3.16, 7.4.1 and 7.4.3 hold. The cluster app-
roximation is defined by Cebysev interpolation. The order of expansion is chosen as
m = O (log N) [see (7.73)].

Generating the Cluster Tree

The cluster tree is generated level-by-level by the procedure generate_cluster_tree
(Algorithm 7.1.8). The set of sons is generated for all clusters belonging to the
current level. This results in a total computational complexity of O (N) per level
and O (N € ,x) for the entire cluster tree. If we use (7.77) with ¢ = Z we obtain

Liax < log N/log4

and O (N log N) arithmetic operations for the generation of the cluster tree. This
requires a memory capacity of O (N) floating-point numbers.

Generating the Covering

The covering P is generated by the procedure divide by a recursion over the tree
levels. On every level £ > 1 all pairs (0, s) € Ty x T; whose fathers do not satisfy
the admissibility condition are checked for admissibility. Therefore the associated
geometric blocks (I's, I's) are contained in (I" x I"), [see (7.83)] and their number
can be estimated as in (7.86). By summing over all levels we obtain [see (7.87)] a
computational and memory complexity which is proportional to O (N).

Generating the Shift Coefficients

For the computation of the shift coefficients in the Lagrange representation we use
the recursion (7.42) combined with Definitions (7.43) and (7.44)

View,e = Auy i Qus,va,in,dus,vz,is-

Computing the coefficients a; j,, foralll <i <m,1 < j <iand1 <k <3is
performed by recursion (7.42) in O (mz) operations. It is only necessary to compute
and store the coefficients a; ;,, in this phase. These coefficients can be multiplied
by each other as is necessary during the upwards and downwards paths, for example,
for the computation of
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The computational complexity and memory requirements therefore consist of at
most O ((HT) X mz) =0 (N log? N) operations.

Computing the Expansion Coefficients

For every block b = (0,5) € P/% there exist O (mﬁ) expansion coefficients
Ku,v (b) that are defined by

G (E(u), g(v))

L VETm

for the interpolation points (£, {0) wves, C Qo x Q. The overall com-
putational complexity for the computation of all far-field coefficients therefore
consists of O (ﬁPf‘” X m6) =0 (N log® N) operations and requires memory

o (tIPf‘” X m6) =0 (N log® N) floating-point numbers.

Computing the Basis Far-Field Coefficients

We will restrict ourselves here to determining the complexity for the computation
of the coefficients

L = / bi (%) DY) (x) dsy.
supp b;

The coefficients R{(:’}) can be computed with the same computational cost.

We achieve this by decomposing supp b; into O (1) many panels and by apply-
ing the quadrature described in (7.48). Per panel the integrand has to be evaluated in
o (mz) interpolation nodes. For any panel t C supp b; we denote the associated set

of quadrature points by (¢®)) _ . In order to evaluate the integrals (Lg‘})

)uel)m

we need to evaluate (CDgL}) (¢ ("))) uer,, We use the Algorithm evaluate DL to

vel,,

vel,
evaluate the expansion functions @E;‘}). This requires a computational cost of O (m3)
operations per point {*") and a cost of O (m®) operations for all points ({®) L

Analogously, the evaluation of the sum in (7.48) for all v € L,, requires O (m5 )

arithmetic operations by assuming precomputed values (@E;‘}) (Z ("))) . Over-

MELM
vel,,

all, this results in a computational complexity of O ((HD x m> ) =0 (N log®> N )
operations.
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Computing the Near-Field Matrix
‘We have for the number of near-field matrix elements
gpP"e" <gP < CN.

In Chap. 5 quadrature methods were developed that allow for an approximation of
the near-field matrix entries with the required precision in O (log4 N ) operations
per element. The total cost for the computation of the near-field matrix therefore
consists of O (N log* N ) operations and the memory capacity in a sparse matrix
representation consists of O (N ) floating-point numbers.

All the computations that we have discussed so far only need to be done once
during a preparatory phase. The following steps have to be performed once for every
matrix-vector multiplication.

Evaluating the Upwards Recursion

Per cluster the operation

WeR: RO = Yyl RO

VERmMm

has to be evaluated. Since fR, = O (m3) this yields an overall complexity of
O (#T x m®) = O (N log® N). Storing all coefficients R requires storage of
0 (N log® N ) floating-point numbers.

Evaluating the Cluster—Cluster Coupling

Per block the expression

BM = 3 ) #kwu®)RY

oeP/ar(c)n€Rm(v)

has to be evaluated. For every ¢ € T Theorem 7.4.8 gives us the estimate
gPfer (¢) = O (1). For v € L,, we have for the Cebygev interpolation the equality

iRm (V) = iR = §Tm = m”>.

This yields an overall complexity of O ((jiT) x 1 x m6) =0 (N log® N ) oper-
ations. Storing all coefficients (Bc(v)) cer requires O (N log® N ) floating-point
VEL,

numbers.
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Evaluating the Downwards Recursion

The complexity for the downwards recursion is the same as for the upwards recur-
sion and therefore consists of O (N log® N ) operations and requires a memory
capacity of O (N log* N ) floating-point numbers.

Evaluating the Matrix-Vector Product

The evaluation of the matrix-vector multiplication by means of the near-field matrix

and the precalculated coefficients Lg? and Egﬁ? is given by
Viel: vi= Y. (Kuea)ijui+ y LEBY.
{jyeprear({i}) WELm

For every i € 7 we have §P" ({i}) = O (1) (see Theorem 7.4.8). This yields
an overall complexity of O (tII X (1 + m3)) =0 (N log® N ) operations for this
phase. Storing the resulting vector v requires space for N floating-point numbers.

Theorem 7.4.10. Let Assumption 7.4.9 be satisfied. Then the computational cost of
the cluster method for the approximation of a matrix-vector multiplication is given
by O (N log® N) operations and the memory required is given by O (N log® N)
floating-point numbers.

For special kernel functions (Laplace/Helmholtz) the asymptotic complexity can
be reduced by choosing special approximation systems (see Sect.7.1.3.2). For a
detailed description of these modifications we refer to [77,78,110,111, 194].

Remark 7.4.11. The estimates that we have presented here illustrate the reduc-
tion in asymptotic complexity of the cluster method in comparison with the usual
matrix oriented representations. Whether this asymptotic behavior becomes evi-
dent for problems with a size that is more common in practical applications, i.e.,
N = 103 — 2 x 104 strongly depends on the efficiency of the implementation.
Numerical experiments have shown that the reductions in computational time and
memory capacity become evident from about N = 500 for standard problems
(Laplace) (see [122, 148, 152, 198, 205]).

7.5 Cluster Method for Collocation Methods

The discretization of a boundary integral operator by means of the collocation
method requires a boundary element space S of dimension N = dim S and a set of
collocation points Z C I' with N = {7 (see Remark 4.1.26). We assume that the
set Z is chosen in such a way that the interpolation problem:
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Find u € S such that u (x) = wy VxeZl

has a unique solution for all mesh functions w = (wy) ey € CL.

The collocation solution uf{” € S for the boundary integral equation

Au= f

is defined by
(A x) = f(x)  VxeLl (7.90)

Let A be a boundary integral operator of the form
A=Al + K with (Ku)(x):/Ak(x,y)u(y)dsy vVx eI
r

In order to ensure that the collocation method is well defined we assume that AS C
com).
The cluster method for Galerkin discretizations can be transferred to collocation
methods with small modifications.
For this we define the space V' as the span of delta distributions in the collocation
points
V :=span{éy : x € T}

and use (8x)ye7 as a basis for V. Then the collocation method can be written in the
“variational form”: Find u$"" such that

a(us,v) —v(Auw”)—v(f) VveV.

The cluster algorithm can be easily generalized to handle the bilinear forma : S x
V — C. It turns out that for the collocation method only the definition of the left
far-field coefficients L" in (7.34) has to be replaced by

LY =0 (x)  YveLln

and the definition of the near-field matrix has to be replaced by

fpk(xz,y)b () dsy if (i}, {/}) € P,

(Knear) i,j otherwise.

7.6 Remarks and Additional Results

In the present chapter, we introduced the panel-clustering methods for the fast
numerical evaluation of discretized integral operators applied to vectors; this is the
key step in the iterative numerical solution of the large, densely populated matrix
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equations which result from the boundary element discretization of BIEs. Formally,
these methods allow the reduction of the matrix-vector multiplication from O(N?)
to log-linear in N complexity, and are the key reason why boundary integral equa-
tion based methods are today highly competitive solvers for linear elliptic problems.
In [104], a version of the panel-clustering method for optimally refined, anisotropic
meshes has been developed.

Naturally, as in previous chapters, problems with the panel clustering and the
related, Fast-Multipole-Method (FMM) type approach arise with high frequency
scattering, since the truncation error introduced in the complexity reduction is not
uniformly small with respect to the wave number. Special versions of the FMM are
available, however, which do exhibit log-linear scaling complexity independent of
the wave number. We refer to [77,78, 194], for example. All these references have
in common a very carefully tailored multipole expansion in different regimes of the
frequency.

An alternative approach which has emerged in recent years and which is, at least
in key components, related to FMM and panel clustering, is the concept of so-called
hierarchical matrices (M- and H?-Matrices). We refer to [19, 24, 118-121]. Here,
no explicit, wave number dependent FMM expansion is required, as optimal, sepa-
rated approximations of the kernel of the BIE are generated by means of recursive
(over all clusters) adaptive low-rank matrix approximations. Another automatic and
purely algebraic approach for the sparse representation of non-local operators is the
Adaptive Cross Approximation (ACA). We refer to [19, 20, 25, 103] for details.






Chapter 8
p-Parametric Surface Approximation

In practice, the description of the “true” physical surface might be very compli-
cated or even not available as an exact analytic function and has to be approximated
by using, e.g., pointwise measurements of the surface or some geometric mod-
elling software. In this chapter, we will address the question how to approximate
quite general surfaces in a flexible way by p-parametric boundary elements. Sur-
face approximations for integral equations and their influence on the discretization
error have first been studied systematically in [167]. Further papers on this topic are
[168], [80, Chap. XIII, Sect. 2], [84], [21], [63, Sect. 1.4].

For the error estimates, we will need some tools from elementary differential
geometry. In order to keep this book self contained we have included Sect. 8.4,
where these tools are developed.

Readers who are interested in the practical application of p-parametric surface
approximations and not so much in the convergence analysis will find in Sect. 8.3 an
overview of the required polynomial orders for the p-parametric approximations.

8.1 Discretization of Boundary Integral Equations
with Surface Approximations

In this section, we assume that T is the surface of a bounded domain  C R3. We
emphasize that the concept of p-parametric surface approximation can be applied
verbatim to one-dimensional boundaries of two-dimensional domains  C R? and
in higher dimensions as well.

8.1.1 p-Parametric Surface Meshes
Jfor Globally Smooth Surfaces

The approximation of I starts with the construction of a mesh G which consists
of plane, open triangles with straight edges.

S.A. Sauter and C. Schwab, Boundary Element Methods, Springer Series 467
in Computational Mathematics 39, DOI 10.1007/978-3-540-68093-2_8,
© Springer-Verlag Berlin Heidelberg 2011
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Definition 8.1.1 (Affine Surface Approximation). Let I be the boundary of a
bounded domain Q. A set G¥f"® := {7, 15, ..., Tx} consisting of plane open trian-
gles with straight edges in R? is an affine surface mesh for I" if Conditions 1-3 are
satisfied:

1. G¥fire i5 a regular boundary element mesh for

Fafﬁne — U 7.

T egzlfﬁne

2. I#ffine jnterpolates the surface I at the vertices of the triangles.
The reference mappings x2" :  — t are affine.
4. There exists a bi-Lipschitz continuous lifting gaffine . T _, Taffine j o there exist

constants ¢2ffine Caffine - () gych that

»

cafﬁne Heafﬁne (X) _ eafﬁne (y) ” < ||X _ y” < Cafﬁne Heafﬁne (X) _ eafﬁney” VX, y € T.
8.1)

We refer to I'*"¢ a5 the affine surface approximation.

Remark 8.1.2. We restrict ourselves to simplicial surface meshes because then
G¥ine consists of plane triangles while the bilinear images of the unit square would
be, in general, curved quadrilaterals.

The definition of the abstract surface lifting 93" : ' — T'affne typically depends
on the concrete application. We will consider a construction which is based on the
following assumption.

Assumption 8.1.3. There is a neighborhood Ur of ' and a mapping P : Upr — T
such that:

(a) Fafﬁne C UF~
(b) P|pafine : raffine 5 T g bi-Lipschitz continuous, i.e., there exists a constant
cp > 0such that

cplx=yll =P ) —PWI=cp'Ix—yl  Vxyere
(c) For any t € G and ¥ := P (), the restriction P|, : T — T isa ck—1
diffeomorphism for some k > 2.

If Assumption 8.1.3 is satisfied, we may simply set
Gafﬁne := (P|Fafﬁnc)_1 : F % Fafﬁne.

The p-th order parametric surface approximation will be defined by employing
4 )} denotes

the mapping P as in Assumption 8.1.3. Recall that {ﬁzlpi) 2, )) ey
the set of nodal points on the reference element and N 8’ i.) is the Lagrange basis on

7 corresponding to the nodal point ﬁ(,-’ -
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Definition 8.1.4. For given panel T € G and degree p > 1, the p—parametric
reference mapping x , of degree P is (componentwise) the p-th order nodal inter-
affine ie Aep = Ip (P ° Xafﬁne)

polation of P o y? It has the explicit representation

e @)= T RO ® Vit B = port ()
i,j ELT

For r € G the image y.,, () is the p—parametric panel of degree p. The
mesh G7 := {)., (?) : T € G} is the p—parametric surface mesh of degree p.
The p—parametric surface approximation of degree p corresponding to G? is

r?:= U

Tegr

ek}

Remark 8.1.5. The p-parametric reference mapping xr,p : T — T is component-
wise a polynomial of maximal degree p. The definition of x-,p does not require the
analytic knowledge of the pullbacks P o )(afﬁ"e for all X € T but only the discrete

images of the nodal points P o)("ﬁ‘fﬁ“e (?Ei,j))for all reference indices (i, j) € L;. In

practice, such discrete images can be obtained either by measurements or by using
geometric modelling provided by CAD-programs.

For p = 1, the mesh G' = G s independent of the choice of the surface
projection P since all nodal points of G lie on the true surface.

The analogue to Assumption 8.1.3 for p-parametric surface approximations of
higher order reads as follows.

Assumption 8.1.6. The mapping P : Ur — I as in Assumption 8.1.3 satisfies:

(a) T? C Ur.
(b) P|rp :T'? — T is bi-Lipschitz continuous, i.e., there exists a constant cp > 0
such that
cplx—yll <P X)—PmI<cp'lIx—yl vx,y € T'2.
(c) Forany © € GP and ¥ := P (%), the restriction P|; : T — ¥ isa C*!

diffeomorphism for some k > 2.

If Assumption 8.1.6 is satisfied we set

P =(Plpp)".

Notation 8.1.7. For the panels in G¥fin we ) write T and use them as counting

indices. For the lifted panel on G?, we use a “~” notation and write T = lift; p, (7),

where lift; p 1= y,p o (x2™)" "1 > % For the corresponding panel on the
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original surface we use a superscript “~ ” and write T = P (%) = lift; (t), where
lift; ;= P olift, p.

In the case of globally smooth surfaces, the orthogonal surface projection is well
defined in a neighborhood of I'. This choice will lead to estimates in the analysis of
the surface approximation errors which are improved by one order of 4 compared
to more general mappings P. The proof of the following example can be found in,
e.g., [100, Lemma 14.16].

Example 8.1.8 (Orthogonal surface projection). Let I' be the surface of a boun-
ded domain Q C R3 of class C¥ for some k > 2. This implies that there exist § > 0
and a tubular neighborhood V of T' such that the mapping

YT x]-8,8—>V ¥ (x,5) =X+ sn(x) 8.2)

is a Ck= diffeomorphism. Thus the orthogonal projection P : V. — T resp. the
oriented distance function dist : V — |—6, 8[ are well defined by

P(x+sn(x))=x and dist(x+sn(x)) =s

and of class C*~" resp. C*.

Remark 8.1.9. The case d = 2 is special because, for sufficiently small mesh
width h, the projection P can always be chosen, locally, as the orthogonal surface
projection, i.e.,

Vx € 1 e giffine x—x 1 Tg,

where X = P (x) and Ty denotes the tangential plane at T = P (7) in X.
This is due fo the fact that for sufficiently small h;, 8, and any X € T, the line
{X+sn(X): s € [-8,8]} and T have a unique intersection point.

In the case of anisotropic boundary value problems, where the principal part of
L is given by — div (A grad u) with some positive definite A # I, the role of the
orthogonal surface projection is played by the conormal surface projection.

Example 8.1.10 (Conormal surface projection). Let I" be the boundary of a boun-
ded domain Q C R3 of class C* for some k > 2. Let A € R3*3 be positive definite
and define the exterior conormal vector at z € T" by v(z) = An(z). This implies
that there exist § > 0 and a tubular neighborhood V of T such that the mapping

W:Fx]—S,S[—>I7 v (X,5) =X+ 5v(X)

is a C*=V diffeomorphism. Thus the conormal projection P : V. — T resp. the
Sfunction disty : V — |—8, §[ are well defined by

P(x+sv(x)) =x and disty (X +sv (X)) =s (8.3)

and of class C*~" resp. C*.
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Proof. The proof of Example 8.1.8 is based on the introduction of a local coor-
dinate system (t;(x),t>(x),n(x)) at some points x € I and the application of
the inverse mapping theorem along with the compactness of I". The positive def-
initeness of the diffusion matrix A implies (v(x),n(x)) = (An(x),n(x)) > Amin,
where A, is the smallest eigenvalue of A. As a consequence, the transformation
(t1(x), t2(x), n(x)) — (t1(x), t2(x), v(x)) is regular and hence the asserted proper-
ties of the conormal projection (8.3) are inherited from the analogous properties of
the orthogonal projection. O

Remark 8.1.11. In some applications, the function P : Ur — T, which is used in
Definitions 8.1.1 and 8.1.4 for the construction of the p-parametric surface approx-
imations, is not explicitly given. Instead the surface mesh is given in parametrized
form by a set of pullbacks xi : T — R3, k € I, where I is some finite index set. We
assume here that

Gi={ @) :kel}

is a surface mesh for T in the sense of Definition 4.1.2. If the evaluation of the
mappings xi and their derivatives are costly it is recommended that xy be replaced
by a p-parametric approximation

Y =17 () and G :=10f (¥): £ € G,

where the lifting is defined by 9,5 = Xk,p© )(1:1. Note that, in general, 0F is not the
orthogonal surface projection.

8.1.2 (k,p)-Boundary Element Spaces with p-Parametric
Surface Approximation

The definition of boundary element spaces as introduced in Chap. 4 has to be modi-
fied slightly if the original surface is replaced by its p-parametric approximation.
The p-parametric surface mesh G? is characterized by the set of parametrizations

—X)p — {X‘r,p ‘T e gafﬁne}

which map the reference element 7 to the panel y., (f) € G”. (Recall that we
always use the elements of the affine mesh G*" as the counting index for mesh-
related quantities such as the pullbacks {yz,, : T € G*"°}.)

Definition 8.1.12. For given p > 1, let G? denote a p-parametric surface approx-
imation of degree p. The space of (k, p)-discontinuous boundary elements of
algebraic degree k € Ny and geometric degree p is given by

SEX;;I = {w:rPﬁKwregafﬁne: wOXr,pG]P’kA}~
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The space of (k, p)-continuous boundary elements of algebraic degree k € N and
geometric degree p is given by

S;’Z ={y € CO(?) | VT € G*™ : Yo yr, € P}

Remark 8.1.13. If parts of the sub- and superscripts in the notation Sfx;r are clear
4

from the context, we will write for short S&0P, Sk:1.P §k:P_ op simply S.

Note that the functions u € Sk"? , in general, are not defined on the true surface.
The approximations to the exact solution are obtained by using the surface projec-
tion by means of u o 7. For a function v : '? — C, we denote by v the lifted

function
Vi=vof?:T —C (8.4)

8.1.3 Discretization of Boundary Integral Equations
with p-Parametric Surface Approximation

We will consider the abstract problem:

Findu € H : b(u,v) =F (v) Vv e H. (8.5)

The Hilbert space H, typically, is a Sobolev space HS (I"), s = —1/2,0, 1/2 resp.
a suitable closed subspace. The functional F € H' denotes a given right-hand side
which, possibly as, e.g., in the case of the direct method (cf. Sect. 3.4.2), might be
defined via integral operators. For the boundary integral operators V, K, and K’ (cf.
Chap. 3), the sesquilinear form b (-, -) has the abstract form

b (u,v) = (Bu,v)2(r) (8.6)

with the boundary integral operator

(Bu) (x) = A1 (X) u (x) + Az (x) /r k(x,y)u(y)dsy xeae. (8.7)

For the integral operator W, the kernel function is hypersingular and we choose the
regularization via partial integration (cf. Sect. 3.3.4). The sesquilinear form is given
by [cf. (3.3.22)]

b(u.v) = /F k1 (5) (el o (), o207 ()

+cka (X, y) u (y) v (%)} dsydsy (8.8)
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with
kixy)i=Gx-y) and kxy) =G x-y)(A"nx.A" ).

Assumption 8.1.14. The kernel function k : T x I' — C is either a fundamental
solution G : R3® — C [cf (3.3)]

1 ebzha—Alzlla

G(z) =
@ drr/detA  ||z]la

(8.9)

or a suitable Gdteaux derivative:

k(xy) =G (x~y),
k(x.y) =G (x—y) /dvx
k(x.y) = -G (x—y) +2{(b.vy) G (x—y),

k (X9 Y) =G (X - y) (Al/2n (X) s Al/zn (Y)>:

RN oL~

where v = An denotes the conormal vector [cf. (2.103)].

Notation 8.1.15. Existence and uniqueness of the Galerkin solution on the sur-
face T'P will be proved for sufficiently fine mesh width. In this light, we consider
a sequence (Qé’ ) cen Of p-parametric surface meshes with corresponding approxi-

mate surfaces (Ff)kN' We write (Séc’r’p)6 N for the corresponding sequence of
€

boundary element spaces.

If the polynomial orders (k, p) and the regularity index r € {—1,0} are clear
from the context, we simply write Gy, Ty, Sy, 0¢. For the mesh sequence (ngﬁ"e) LeN’
the constants in Definition 8.1.1 and Assumption 8.1.3, resp. Assumption 8.1.6, in

general, depend on £ and we write cz‘fﬁ“e, C eafﬁ"e, CPg.

The following Assumption expresses the requirement that these constants are
uniformly bounded.

affine C affine

Assumption 8.1.16. There exists constants ¢ ,cp > 0, < 00 such that
the constants ci}fﬁ“e, Ceafﬁ“e, cp¢ in Definition 8.1.1 and Assumption 8.1.3, resp.

Assumption 8.1.6 satisfy
V¢ e N Cafﬁne < szﬁne < C;fﬁne < Cafﬁne and cp < cpu.

Example 8.1.17. Let T' = S, and let T¥ pe the double pyramid with vertices
(1,0,0)T, (0,1,0)7, (=1,0,0)T, (0,—1,0)T, (0,0, 1)T, (0,0, —1)T. The mesh G
is the set of the eight triangular faces of T The orthogonal projection P :
rafine . T js given by P (x) = X/ ||x|| and can be extended to an appropriate
neighborhood Ur as required in Assumption 8.1.3.

Recursively, we assume f‘;‘e has been generated for some £ > 1. A finer mesh

ngﬁ“e is constructed by (a) connecting the midpoints of edges of the panels in Gy,
and (b) projecting these midpoints to the surface by means of the mapping P.
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Because the projection P is given explicitly, the construction of the p-parametric
surface approximations I’ f is without any difficulty. This leads to meshes gf
which satisfy Assumption 8.1.16. The proof of this statement is straightforward but
somewhat lengthy and will be skipped.

The Galerkin boundary element method of algebraic degree k and geometric
degree p for the discretization of (8.7) consists of two steps (cf. Notation 8.1.15):

e Replacing the true surface by the p-parametric approximation:
Finduy € Sy : by (ug,v) = Fy (v) Vv e §y. (8.10)

The perturbed sesquilinear form is given for the boundary integral operators
V, K, and K’ by
be (u,v) = (Beu,v)12r,) »

where
(Beu) (x) = A1, (%) u (X) + Az ¢ (X)[F ke(x,y)u(y)dsy  xeTlgae.
12
and, for the hypersingular operator W, by

by (u,v) == [ {k1,e (x.y) (curlr, a0 u (y) . curlp, a2n ¥ (X))
F(XF(
Hekae (X, y) u (y) ¥ (%)} dsydsx.

The kernels k¢ : Ty x Ty — C which correspond to the four cases in
Assumption 8.1.14 are given by:

Lokg(x,y) = k10 (x,y) =G (x—y).

2. kg (x,y) = 0G (x—y)/0vix, where v; := Any. The matrix A is as in
(2.98) and ny denotes the normal field at the p-parametric surface I'y pointing
towards the unbounded exterior domain. The notation v,  indicates that the
Gateaux derivative is applied with respect to the variable x.

3. ke (x,y) =0G (x—y) /0vey 4+ 2(b,vey) G (x—y).

4. kay (x,y) = G (x—y)(AY?ng (x),AY2ng (y)).

Furthermore, the (real-valued) coefficients A; ¢ and A, ¢ are defined by A; ¢ :=
A10 9[1 , A2 1= Ap0 9[1. Note that in most cases A1, A, are piecewise constant
implying that Ay ¢y = A7 and A, 4 = A».

Remark 8.1.18. We do not discuss the approximation of the right-hand side F (v)
in detail, since its accurate evaluation strongly depends on the specific problem. As
a rule of thumb, one replaces integrals over I by integrals over I'y and (expressions
containing) the conormal vector field v by Any. The arising approximation of the
functional F in (8.10) is denoted by Fy.
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e Lifting the approximation uy to the true surface:
The p-parametric Galerkin approximation to the exact solution of (8.5) is
given by
Ijl( ‘= uUyo 9[. (8.11)

8.2 Convergence Analysis

In this section, we will address the question how the degree p in the p-parametric
surface approximation has to be chosen such that the convergence rates of the
unperturbed Galerkin discretization (on the exact surface) are preserved. The dis-
cretization parameter for the mesh G, is the mesh width /4y. In this section, we
will investigate the convergence of the corresponding sequence (uy), of Galerkin
solutions.

For the continuous problem (8.5) we assume existence and uniqueness via the
following conditions.

Assumption 8.2.1. 1. Continuity: There exists C > 0 such that
Vu,ve H : b (u,v)| = C llullg VIl g

2. Gardings’s inequality: There exist a constant ¢ > 0 and a compact operator
T : H — H’ such that

VYueH : |b (u, 1) — (Tu,u) gy = ||ull3-
3. Injectivity: For all v € H\ {0},
b(u,v)y=0 = u=0.

In order to compare the sesquilinear forms b (-, -) and by (-, -), we will lift the
sesquilinear form by (-, -) to the true surface I'. For t € G*i"® and 7 = lift,, ()
(cf. Notation 8.1.7), the pullback of the corresponding panel ¢ = P (7) C I to the
reference element is the composition

Xt =Poyp:T—T1. (8.12)

The function p; : I' — R, is the quotient of the square roots of Gram’s
determinants for I and I'y. We define p; : I' — R piecewise, for x € t C Gy, by

(g‘t,p o Xr_l) (%)

pe) = gro X' (x)

Here, g; : T — R denotes the surface element of t € Gy and g, is the surface
element of the corresponding p-parametric panel. Explicitly, we have
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g }) = VdetG: (}) with G, (®) :=J7 ®)J: (%), (8.13a)
gep (X) = /detGep (X) with G p (R):=J1, (X) I, X) (8.13b)

where J; (resp. J+,p) is the Jacobi matrix of y (resp. x¢,p).
The following quantities will enter the error estimates

pe = llpelsoqry and 7 = [loe = 1l poo(ry - (8.14)
By employing the function p;, we may define the lifted p-parametric boundary

element space by 5
S¢ = {uoeg ‘ue Se},

and the lifted sesquilinear form l;e . 8¢ x S¢ — C as follows:

o For the boundary integral operators V, K, and K’,
b .9) = [ 2400 TR0 e () d
r

- / A (X) ¥ (X) pe (%) ( / ke (x,y) it (y) pe (y)dsy) dsy,
T T

where k¢ (x.) 1= ke (6 (%) .6 (v):
o For the hypersingular integral operator W,

b i) i= [ pe 00 e (59 {(eurtn, ) @) (o a2 ) )

tekay (X, Y)it (Y)Y (x)} dsydsy, (8.15)

where k; ¢ (X, y) 1= ki ¢ (0 (%), 0¢ (y),i = 1,2,and ¥ := Vo8, ', 7 1= Vo b,
andX := 0 (x),y := 0 (y).
e The lifted right-hand side Fy : Sy — C is given by
Fo (i) := Fy (0 6;7").
Remark 8.2.2. (a) For all u,v € Sy and corresponding lifted u,v [cf. (8.4)],
by (u,v) = b (it,%)  and Fy () = Fy (u).

(b) The Qalerkin solution 1y in (8.11) can be characterized equivalently: Find
g € Sy, such that

by (itg, ) = Fy (%) Vi, € Se.
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Since the sesquilinear form l;g and the right-hand side Fy are both defined for
functions on the true surface I', we may compare them with the original sesquilinear
form b and right-hand side F. In order to ensure well-posedness of this problem
and quasi-optimal error estimates, we employ the concepts of uniform continuity,
consistency, and stability as introduced in Sect. 4.2.4.

1. The family of sesquilinear forms by (-, -) : S¢ x S¢ — C is uniformly continuous
if there is a constant C such that

Vive Sei b ()] < C lullg vl - (8.16a)

2. The family of lifted sesquilinear forms 154 () S o X S¢ — Cis uniformly stable
if there exists a null sequence (c¢), such that

ViLve Sp: (b (i) — by (1,7)| < ¢ Nl g 1Vl g - (8.16b)

3. Let U be a subspace of H with continuous embedding and S¢ € U. (Note that
the trivial choice U = H is always possible.) Let the exact solution be U -regular,
i.e, the solution u of (8.5) satisfies u € U. The family of lifted sesquilinear forms
bg () :S¢xS; — Cis uniformly consistent with respect to |- ||, if there exists
a null sequence (8}), such that

Vi ve S ‘b(a,v)—ég (it, )

<8y llitlly 9]l g - (8.16¢)

4. The family of right-hand sides Fy(): S — Cis uniformly consistent if there
exist a constant Cr which depends only on F and a null sequence (8?) ¢ such
that

Viie S : ‘F(a)—

< Cré} il g - (8.16d)

Remark 8.2.3. Let the exact solution satisfy u € U. Conditions (8.16) imply, by
means of Strang’s lemma (cf. Sect. 4.2.4), that the error of the exact solution u and
the (k, p)-boundary element approximation iy can be estimated by

lu—itellgr < C (lu—Teull g + 8 llully + Cr8y). (8.17)

where I1y : H — Sy denotes the orthogonal projection with respect to the scalar
product (-, ). The first term on the right-hand side of (8.17) can be estimated as in
(4.158).If H = H*® (') for some s € {—1/2,0, 1/2}, if the polynomial order for the
boundary element functions equals k, and if problem (8.5) has full H**-regularity,
the error estimate

v k41—
ot =il sy = € (X' Nl gy + 8l + CrY)
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follows. Hence the optimal convergence order is preserved if the family of sesquilin-
ear forms is uniformly stable, and both 8; and 8? are bounded from above by

C]’lk-H_s.

In view of the Strang’s lemma it suffices to estimate the constants in the estimates
(8.16). We write the sesquilinear form b (-, -) as a sum

bu,v)=b"1,u,1,v)+b"(1,u,1,v),

where

b (wi,u, wa,v) i= / Awa (X) V(X) wy (X) u (X) dsx
r
and

e For the boundary integral operators V, K, and K’,

NWmmmw:/@ﬁﬂm@W@%/kwwMWMww%wk
r r
o For the boundary integral operator W, we set b' = 0 and

B oo iwa, ) = [ wa w1 @) [ ) ((ewrran ) @) (ewira ) )

+ cko xy) i)y (x)} dsydsy.

Note that the use of the real-valued weights wy, ws in the sesquilinear forms b'
and b allows us to express some error splittings in a more compact way.
An analogous splitting is employed for the sesquilinear form by (-, -)

b (u,v) = by (1, pe,v) + by (pe. . pe.v)
The difference of the sesquilinear forms b (-, -) and by (-, -) can be written in the form
5 3
b (it, V) — be (it.¥) = Y _ e; (it.¥).
i=1
where
€1 (ﬁa ‘\;) = bI (19 '\'29 (1 - pe) ) i/)) + bH (1’ Zt, (1 - pe) 9{))

ez (,v) = b" (pg, it, pe, ¥) — by (pg, it, pg, V) (8.18)
e3 (it,V) = b ((1 — pg) . it, pg. V) .
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Lemma 8.2.4. Forallu € L?> (') andw € L™ (I"),

[wull 20y < C Wl Loo(ry 1l L2(ry -

The estimate of the sesquilinear form e, is based on an estimate of the difference
of the kernel functions k and ]gg. Let k be defined as in Assumption 8.1.14. Since
norms are equivalent in finite-dimensional spaces there exist constants ca, Ca > 0
such that

ca [ull < Jufly < Ca|ul Yu € R3. (8.19)

In the following convergence analysis, certain geometric quantities dy, J@, &g will
determine the convergence rates of the (k, p)-boundary element method. Let

Ix — ylIx — 110 (x) — 0 ()15 |

d¢ '= max sup = (8.20a)
ae{—1,1,2} x,yeI' ”X - YH
XF£y

and

dg:= sup ||x—y— (0, (x) — 0, (y)|| and e := Cx [|b||, d¢ + (diamT') || d,
x,yeI'
oty
(8.20b)

where A, b, A are as in (3.3), (8.9). B
First, we prove convergence estimates in terms of dy, dg, &¢, while the conver-
gence rates of these three geometric quantities will be estimated in Sect. 8.4.

Lemma 8.2.5. Let the kernel function be defined as in Assumption 8.1.14(1). Then
there exists a constant C > 0 which depends only on the coefficients of the differen-
tial operator L and the diameter of I such that

. 1
Vx,ye I,x #y, k(x,y) —ke (x,y)| < C (g7 + dp) yp (8.21)

Proof. For x,y € T', let X := 0y (x) and y € 6, (y). The differences are denoted by
Zz=y—xandz:=y —X. Then

ebzha—Allzl e(b:Eha—Alzlla

kxy) -k xy) = ——o o (2.7) F —
(x.y) —ke (x.) 47{«/M||z||A§2( ) oA

$1(z.2).

where

@2 =zl - 2l and & (2,7) = 1 — B A,
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The definition of dy immediately implies that

5 - ~ Assumption 8.1.6b de (8.19) de
81 (2,2)| < de/ ||zllx < de/ ||Zl|a =

< —,
cpea ||zl cpey ||z
(8.22)

while the exponent in the definition of {, can be estimated by
[(b.z—2z), — A ([|Zlls — z)] < [Iblla 2 —zllx + A de 2] < ¢ < c.

This leads to B
182 (2,Z)| < e“eq.

Since the surface is bounded there is a constant C > 0 such that

eba—Allzla eda—Allzly
sup ——— < C and sup —_— <. (8.23)

x,yeI' detA x,yeI' VdetA

=Xy 7=0,(x)—0¢ (y)
Thus we have proved that

v C
k(x.y) —ke(x,y)| < (e¢+dy)  Vx,yel,x#y,
4m |||

where C depends on the coefficients of the differential operator. O

For the proof of the following lemma, we will employ an inverse inequality in
the form
N -1/2
VueS  ullgary < Gkl g-1/2r - (8.24)

The constant Ci,, is moderately bounded for shape-regular and quasi-uniform
meshes. In addition, it depends on the polynomial degree of the shape functions
(cf. Theorem 4.4.3).

Corollary 8.2.6. Let the kernel function be defined by Assumption 8.1.14(1). Then
there exist a constant C > 0 which depends only on the coefficients of the
differential operator L, the diameter of T and Ciyy in (8.24) such that fors = 0,1/2

Viie S [b @) —be @ )| = 7 e+ d 3+ L+ 5o B2
il s oy 191l =172 -

Proof. We start with the estimate of the sesquilinear form e, as in (8.18). The
monotonicity of the Riemann integral allows us to use (8.21) to get

lpe (¥) i (9] |pe (%) V ()]
dr |x =yl

le2 (1, V)] < C (g¢ + de)[ dsydsy.
rJr
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The continuity of the single layer potential for the Laplace operator [from L2 (T") to
H' (I') (cf. Theorem 3.1.16)] implies the continuity from L2 (T") to L2 (T"). Thus

lpe () i (Y)] [pe (%) V (x)]

lea (12, V)] < C (g¢ + de)/ dsydsy < C (g¢ + dy)
rJr

dr [x =y
locttll L2ry 1PeV Nl L2(ry
Lemma 8.2.4 _ v v
< C(ec+do)pp il L2y IVl L2y - (8.25)

where py is as in (8.14). The inverse inequality (cf. Remark 4.4.4) finishes the
estimate of the sesquilinear form e;.

The estimates of the sesquilinear forms ey, e3 are simpler because no perturbation
of the kernel function appears therein and we may directly apply the continuity of
the original boundary integral operator to obtain

le1 (@, V)| = |b (i, (1 = pe) V)| < C [t 2y (1 = pe) V]l L2y
Lemma 8.2.4 A v .
< Cog llall L2y Wl L2y - (8.26)

In a similar fashion, the estimate

les (i 9)| < Cep Nl oy 191 L2y (827)

is derived and an inverse inequality finishes the proof. O

In the following we will briefly explain why our proof does not give a better
estimate if we employ the H ~'/2 (I")-continuity of the single layer potential directly
instead of the L2 (T')- -continuity along with an inverse inequality.

Note that the inclusion S < L2 (T') implies that |pgit|, |p¢V] € L2(T) C
H~Y2(T) holds for all i € S. Hence in (8.25) we could employ the H /2 (I)-
continuity of the single layer potential to obtain

le2 (i, V)| < C (e¢ + do) lllpettlll =172y eVl | =172 (ry - (8.28)

By the continuity of the embedding L2 (I') < H ~'/2(I") and an inverse inequality
the estimate

lpeitlll zr-1/2ry < C Wllpeitlll 2qry < € e itlll L2ry
- v ~;—-1/2 - v
= Cpyllitl 2y < Chy B il -1/

follows. The combination with (8.28) yields

le2 (i, V)| =< Chy' (e¢ +do) il =172y 1Vl =172y - (8.29)
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Example 8.2.7 explains why the estimate
. —-1/2 g
Nl 12y < Chg 2 il g1y Vit € S,

in general, is sharp so that (8.29) cannot be improved along the lines of our proof.
In order to avoid technicalities we consider the H ! (I')-norm instead of the
H~'/2(I")-norm in the following example.

Example 8.2.7. Let @ = (0,1) and N € N. For h = N1 we set x; := ih,
i =0,1,...,N, and define the intervals t; = (xj—1,x;), 1 <i < N, which define
the mesh G := {t; : 1 <i < N}. For a function f : Q@ — R, we define its scaled
and periodic version fP : Q — R elementwise by

X — Xi—1

fPl = foxit with x7'(x) = . 1sis=N
We consider the function
_ J—1x€(0,1/2),
u(x) '_{ 1 xe(1/2,1).
Note that
* 1 1
(=1) - ds == —x| ==
u (x): [0 u(s)ds ‘2 X >
* 1/1 1 1
D= | uD (yds = - [~ _ I
u (x) [Ou (s)ds 2(4 X+ |x 2‘(x 2))

Note that uP*" € Sgo’_1 is piecewise constant. Our goal is to compute ||uP|| g—1(q),
where H™' (Q) = (H{ (Q))'. By definition, we have'

U™, v)12(0)

6P| -1 () = sup (8.30)
erl@\voy  VlE @)
For the computation of the maximizer vy we define the Lagrange function
J W) = @)@ —2 (|V|§{1(S2) - 1)'
The equations for a stationary point (vo, Ao) are given by
/ / 1 per 1
(V07W)L2(S2) ~ 2% W™, w)r2(q) Ywe Hy () A |volgig = 1.

! For simplicity, we employ the H'-seminorm as the norm in H(} (£2) which is equivalent to the
standard norm.
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The strong formulation is
pery// 1 per
—(VO ) = ——Uu N |v0|H1(Q) =1.

20

The solution is the scaled and period version vger of

vo (x) = —% (—xu(_z) (1) + u? (x)) ,

where Ag is chosen such that (vper)/ = 1. Since the scaling in (8.30) cancels
O Tl
we set Ag = 1. We get
N 1 2
2 h
pery/ pery/ -2 712
v = v =h Vvo| = —
H( 0 ) LZ(Q) ;[E, ( 0 ) | 0| 192
and
N 1 h2
cr cr
(uper,vg )LZ(Q) = E [ upervg = [ uvg = %
i=1Y% 0
Hence per
cr
per (P, v )Lz(sz) V3
”u ”H—l(Q) = per = 12 h.
|"o |H1(Q)

Since |[uP*| = 1 we get

e N1 = IMla-1) = C = 0 (1)

so that
per 12 -1 per
[[ue |||H—1(Q) = C—3h | ||H—1(S2)‘

/3

Hence the estimate

-1

Il -1y < lullz2e@) < Ch |lull g—1(q)

cannot be improved in general for piecewise constant functions.
We turn to the estimate of the derivatives of the fundamental solution. For

x,y € I',letx = 0 (x) and y € 0 (y). The error estimates depend on the following
quantities
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n(x).y—x)—(ng(X).y—X)[

nll,e = max_ sup , ny = max sup [n(x) —ng X,
T1,52€G¢ xE€ETY ”y_X” T€Gy xe€T
T1#h yebr

nlze:z max sup |(n(x),y—x)—(ng(x),y—x)|. (8.31)
: ieCy xyet ly — x|l

The proof of the following lemma employs two estimates which will be proved in
Sect. 8.4:

Lemma 8.4.2 ||y—x|| (8.85)
= Cule and %I -

max |98 ‘
Bl=2 H Xep

jul T

coo R.5€7. 349
X=Xt (i), Y=Xxz 6’)
(8.32)

Lemma 8.2.8. Let the kernel function be defined by Assumption 8.1.14(2). Then
there exists a constant C > 0 which depends only on the coefficients of the differen-
tial operator L, the diameter of I, and the constant in Lemma 2.2.14 such that, for
sufficiently small 0 < h < h,

1. Vx,yete QV:
. c 1 I
‘k(x,y) — k¢ (x,y)‘ <— (n” +dy + e+ ||b|| ne). (8.33a)
4 x—yll N~

2. V‘Z’],lv’z (S g, 7,V’1 75 7,V’2, and X € ‘Z’] andy (S ‘Z’z,

I’lll,e +dp+ &g
lIx—yll

v C
’k(x,y)—ke (x,y)] < ”X_y”( + |Ib]| n?). (8.33b)

Proof. For x,y € T', letx := 6y (x) and y € 6, (y). The differences are denoted by
z =x—yandz:= X —§y. We start with the splitting

kxy) —ke(xy) =G @ (Ml xy -2, k¥ +of ®) (834
+(G @)~ G @) (~me & F) +0r &) = A1e K F),

where, for o € {1, 2},

To () 1= ¥ 00), 0 ) = (b.n(x)).
TR

M (xy) = DX b )
TR

Mop (X,Y) := 1l (X ¥) = Nat R, F) . 97 (%) 1= ¢ () — ¢ (%)

Next, we will estimate the different terms in this splitting separately.
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Estimate of nﬁ 0
We distinguish two cases:

1. For x,y € ¥ € G, let X, § be defined as before. Note that X = y., (X), § =
Xz.p (§) holds for X := y;!'(x) and y := Xr_l (y). By using the quantities nlz,e,
d¢ we obtain

x—yn®) &—§.nE)

Ix —yllx % — lIx
2—a 1 —2a ,—«a |(i - 5’, ng (i))|
R P
|(Xr,p (X) — Xt,p (y).ngo0 Xz,p (f‘)>| dy
1% — yII* ’

Net (X. y)‘ =

< Ix—yl dy

< C <hi_“n12’e +
(8.35)

where C depends only on cy, o, and cp.
The first factor in the second term in the right-hand side of (8.35) can be estimated
by repeating the steps in the proof of Lemma 2.2.14. We obtain

[Utep B = xep @ meo xep R _ e . 5 1% $1°
~ ~ —_ f, 2 ’
% - 311 gi=2 1" "o P“X_y(g;a%)

where cp is as in Assumption 8.1.6. From (8.32) we conclude that

Nt (X,y)‘ <Ch>™ (nIM + d() , (8.37a)

where C depepds only on C in (8.36), Cyup, cp, ¢ in (8.32), and c4.
2. Let 71,7, € G with 71 # T and X € T1,y € 7,. In the same way as before we
derive

x—ynx) E-yn®)

A 1—a I
n (X,y)‘= - ‘§C||X—y|| ny,+d).
wt Ix—yiI Ix-3I% (e +)
(8.37b)
Estimate of 7, ¢:
As before, we obtain improved estimates if x, y belong to the same panel
X—¥y.n; (X Ch>™ ifx,yeteg,
o (xy) = LY ROI]_A C YETEO (8370

IkK-31X 1 Clx—y|'™ifxet,ye b
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Estimate of <peA:
By employing the quantity 7]} we obtain

o (0| = 1.0 (0 = e B)] = bl In x) = ne R < bl . ($37)

Estimate of ¢;:
Since ny has length 1,
loe X)| =< [b]|. (8.37e)

We have all ingredients to estimate the perturbation error (8.34) of the kernel
function due to boundary approximation. Again, we will distinguish two cases:

(a) Letx,y € ¥ € .
The combination of (8.21), (8.23), and (8.37) yields

v C
k(x,y) — ki (x,y)| < ——-— (1} d bl n} ).
(9 ke ()| = g (P de + e+ bl )

(b) Letx € 77 and y € 7, for some non-identical panels 71, > € G.
In this case, we obtain

. C n',4di+e
k(x.y) — ke (x.y)] < (” ‘e

< + |b]|nY ],
dr x—y] ¢

x—yll
where C depends on the coefficients A, b, ¢ of the differential operator L. |

Corollary 8.2.9. Let the kernel function be defined by Assumption 8.1.14(2). Then
there exists a constant C > 0 which depends only on the coefficients of the dif-
ferential operator L, the diameter of T, the shape-regularity of the mesh, and the
constant in Lemma 2.2.14 such that

Vive S, ]b(ﬁ, ¥) — by (i, 9)| < C8e ] 2y 192 -

where
0= 5 5 b e+ (kg + do + e0) (1 + Jloghel)

Proof. We coysider first the term e; in (8.18). Forany 7 € G, we introduce a partition
of ' and of G by

gvi = {1}, rl:=1,

gu .= {fleg\{%}:%lmf¢®}, = |7,
%legg

Qvgl::{%legvzaﬂgzﬂ}, rit.= UZ

‘E] Eggl
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With this partition at hand, we employ (8.33) to obtain

|e2(a,v)|52/ 3 /|p«(xm(x>|\k(xy) Fex,y)

Re{I, 11,111}

x |P6 (¥) it (¥)| dsydsx
< C (b +dutee) 323 el ooy el oo
teg

1
x[ ————dsydsy
ixz 4 [[x =yl

+ R (nh g+ de+ee) Y Iellimeiy 3 Nl oo(ry
teg

Re{11,111}
f / L s
X —_—Fdas S
sJrr dn x—y)>

_ g ()| Ve (%)]
+CH2 b nH/ |w—afs dsy
Py ” || V4 rJr 47[||X—y|| y
=851+ 8 +8;s.

Estimate of S;:
By introducing local polar coordinates as in (5.53) with s = 1 one proves for any

T€g .
/ ———dsydsy < Ch3
ixz [x =

The combination of this estimate and Corollary 4.4.6 yields
S1 = C (nh +de+ec) 5he Y el 2gey el 2oy
teg

< C (b +do +ec) P2he Wl oy el 2oy

Estimate of S3:
The continuity of the single layer potential in L2 (T") results in

S3 < Cp bl ng Nitell L2y Vel L2y -
Estimate of S,:

For ngn-identical panels 71,72 € é which have, at least, one common point, i.e.,
71 N T # @, we may use (5.59), (5.60), resp. (5.62) to get

1
[ ————dsydsy < Ch2,,
fixiy [[x—yl?

where the shape-regularity of the panels implies ¢, ~ hz,.
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The shape-regularity also implies that tIC;E = O (1) and hence the summation
over all panels in QVE yields

1
[l ian=or
tJT 4 [|x —y||

For the integral over ¥ x I'/' we argue as in the proof (Part b) of Lemma 7.3.19 to
obtain |
——— dsydsy < Ch> (1 + |logh.|).
/f/l:‘%” 471||X—y||2 v ! [log |
This leads to the estimate of S,

S2 = CpE (nh ¢ + de+ ec) ChE (1 + oghel) Y el ooy liel ooy -

teg
Let #; € G denote the triangle with lzee|l oo (ry = llite || Loo(z,)- By using the inverse
inequality (cf. Corollary 4.4.6) we obtain
v v —1 v —1 v
litellpoo(ry = llitell Loy < hz, litell L2y < by liell L2

from which we conclude with a Cauchy—Schwarz inequality that
S22 CpF ()¢ + de +ec) (1 + lloghel) liell 2oy IFel 22y -
This finishes the estimate of e,
lez (@, V)| < C 7 (ny ghe + (nh ¢ + de + e) (1+ [log he))) [Vell p2ry litel 2 -

The estimates of e; and e3 are based on the continuity of the integral operator
and derived as estimates (8.26), (8.27). O

Corollary 8.2.10. Let the kernel function be defined by Assumption 8.1.14(3). Then
there exists a constant C > 0 which depends only on the coefficients of the dif-
ferential operator L, the diameter of T, the shape-regularity of the mesh, and the
constant in Lemma 2.2.14 such that

Vi v e Sy : ‘b(ﬁ,(;) — by (i, %)

< Cé¢llitll p2qry IVl L2(ry »

where (recall §; as in Corollary 8.2.9)

8¢ 1= Cpy (ny +dg + &¢) + 8.
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Proof. The kernel function for the double layer potential is (recall: vy, = Any)

ad
k(x,y) = WG(X—)’)%-Z(b,Vy)G(X—Y)-
y

The perturbation due to the first part of the kernel function can be estimated as in
Corollary 8.2.9 and we consider only the second summand. Let z := x — y and

Z:=X—Y:= 07 (x) — 0 (y). The splitting

ki (x,y) :=2(b,vy) G () — 2(b, v 5) G (2)
=2(Ab,ny —ng3) G (z) + 2{Ab,ng5) (G (z) — G (2))

leads to

I ®23) [my — g5 c_ s
by (x.y)| < C<T”Z”+|G(X—Y)—G(X—Y)|

(8.37d), (2;22), (8.23) n? +dp + gy
- 4 ||z||

For the estimate

‘ /F . Ky (x,y) it (y) pe (¥) V (X) pe (%) dsyd s

< Cp7 (n} +de + &) llitll 2oy VN L2y

we may argue as in (8.25) and this finishes the proof. O

It remains to estimate the hypersingular boundary integral equation. Let v €
G*fire The pullback of ¥ = lift; (r) € G is x. and its Jacobi matrix is denoted by
J+. Similarly the Jacobi matrix for y. , is J¢,p.

Let . .
J, = ”Jr (X) _Jr,p (X)
¢ i= max sup

regafﬁnc zet hr

) (8.38)
|I-]| denotes the matrix norm which is induced by the Euclidean vector norm. The
proof of the following lemma requires an estimate of the number of mesh cells.
Under a weak assumption on the mesh, there exists a constant Cy such that

fGHne < Cyh 2. (8.39)

The proof of the following lemma uses two results from Sect. 8.4 which reads as
follows. Corollary 8.4.3 states that

viet |G (®| <Ch; and |G, R)| < Ch2 (8.40a)
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while Lemma 8.4.4 implies that
|ge.p ®) < Ch? and  |g: (R)| =< ChZ. (8.40b)

Lemma 8.2.11. Assume that S C H'! (T). Let the sesquilinear forms b and };(
be defined by (8.8) and (8.15). Let Assumption 8.1.6 and the estimates (8.40) be
satisfied. Then there exists a constant C > 0 which depends only on the coefficients
of the differential operator L, the diameter of T, the shape-regularity of the mesh,
the constants in (8.40) and in Lemma 2.2.14, and the constants in (8.39) and the
inverse inequality, such that

b (i1, v) — by (i, )

<C(de+ec+ny+Jo+p)hy i el gr1=s 0y 190 172y

fors =0,1/2and any u,v € S'g.

Proof. We will estimate the sesquilinear forms ey, e3,e3 as in (8.18) and start
with e,.

The kernel function (cf. (8.8) consists of two parts. The estimate of the second
part is simple by using the previous results. Again, letz := x—yandzZ :=X—y :=
B¢ (x) — B¢ (y). We have

KAy =G @ (A n(x). A0 ) - G @ (A0 (0,420 ()

= G (2) ((An(x) ,n(y)) — (Ang (%), g (¥)))
+ (G (2) = G (2)) (Ang (X) . ng (¥)) -

The estimates

|G ()I_4 |G (2) =G (2)| < (de + &)

follow from Lemma 8.2.5, while

4n |||

[{Ang (x),n¢ ()| < C
and
[(An (x) ,n(y)) — (Ang (%) .0 (3))| < Cny

are obvious. Hence we may argue as in the proof of Lemma 8.2.5 to obtain the
estimate of the perturbation in the second part of the sesquilinear form associated
with the operator W

‘ / I (X.¥) pe (¥) ite (¥) pe (X) Ve (%) dsydsy

< Cpj (de + &0 4 ny) llitell L2y Vel L2y
= C'OZ (de + e+ ”e) lzeell gr12my IVell g1z ry - (8.41)



8.2 Convergence Analysis 491

We turn to the first part of the sesquilinear form (8.8). For i = 1,2, fix some
7; € G apdlet 7; 1= lift;, (7;). Define the local sesquilinear form b, -, by

b 9 = [ 6 x=y) feurl a0 1(9) curty a0 7 00) o (9 pr () s
1 X172

We will transform the integrals to the reference element. For i = 1,2, the local
pullbacks of the normal vectors are

n; =no yg.
The column vectors of A'/2 are denoted by a; € R3, 1 < j < 3. Let AX :=
Al/2 x A1/2 € R33 be the matrix formed by the column vectors a, X a3, a3 X a,
a; x ap. Then, for any r € G¥"® and 7 = lift, (¢) € G,
curly g o v = A" curl; g oV + V (A_l/zc X Al/zn;) vve H! (1),
where I is the 3 x 3 identity matrix. The transformation formula (3.79) leads to
(curlz yo¥) 0 xr = J.G7'Vi x ng,

where J; is the Jacobi matrix of y; and G, :=J IJ, denotes Gram’s matrix. Some
tedious but elementary tensor analysis leads to

(curlz o¥) 0y = g7 ' J V1,

where V419 = (029, —019)T and g, := +/detG; is the surface element. We
introduce the matrix A** and the vector wi by

A= (A)TA and wii= (A)T (2472 x AR ). (842)

(If A is the identity matrix we have A'/2 = AX = A** = L) Thus the pullback of
by, v, (i1, V) can be written as

b (9) = [ k&) {4 curbi @) curlib )
™XT
+ (curlai (3), w1 80) &1 R) T (R dyd, (8.43a)

where

k (%, §) =p¢ ®) pe 3) G (xry &) — x5, ) and  curlyiv (§):=J5 §) VI ().
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The pullbacks of the finite element functions are
V=voyxy and U =10 .
To estimate the effect of the perturbation we have to compare by, -, with

@@@w=/

‘E] X‘Ez

ke o 9) (A curly it 3) , curly o )
+ (curly it (3) Wi () 1,6 T )} dsydse,  (8.43b)

where )
ke X.3) := G (xe1.p ®) = Xr2.p §)) Be (%) e (§)

and the remaining quantities are defined by replacing y.; by xx;,p (recall the relation
(8.12) between x,;,p and xz; ).
We have to estimate corresponding quantities in (8.43) and their differences:

1. Estimate of (the difference of) the kernel function
Lemma 8.2.5 implies that

loe (X) pe (y) G (X =y) —pe X) pe (Y) G (x—y)| = C (¢ +dz)5§m

with py as in (8.14).

For the kernel function itself, we obtain (cf. Proof of Lemma 8.2.5)

loe x) pe () G (x—y)| < Cpp—.
4r |x —y||

2. Estimate of (the difference of) the first part of the sesquilinear form (8.43)
We obtain

(A**curlyi ), curls5 () — (A curly ¢t (§) , curly (5 ()
= (A (curbit (§) — curly ¢t ) ,curl ¥ ()
4—<Axxcﬁﬁ§}a(§),dﬁﬁ}§(ﬁ)—-éﬁﬁ]}@(&)). (8.44)
The definition of Jy [cf. (8.38)] implies

Jeurts () — curly 8 )| = | (I ) ~Jap ®) TS

=< JZh‘n

)%@W
Recall that ? = Vo P o y, , so that the chain rule gives us

Vi &) = J7,, ®)IL ®) Vry (x),
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where X (= yq,,p (X), X := P (X) and Jp denotes the Jacobi matrix of P.
The surface gradient is defined as the composition Vrv = ygVZ_v, where Z_
denotes the lifting of v to 2~ (cf. Remark 2.6.12).

The Euclidean norm of J p is bounded

17 ®| =c.
where C depends only on cp in Assumption 8.1.6. Hence

|90 G0 = € 30 @3, GO 2 1907 I

From elementary linear algebra follows the first equality in

V2 =Gy, | T Chey.

|30, RV IT,, B

Thus we have shown that

Hcﬁla(&) — curly b (%) H < Jih?, )?Fv(x) H (8.45)
Similarly, we obtain
|eur i @] = [Ger @2 |V 3| < 02, IVra @I (s462)
The estimate
|euroa )] = o2, 1Vri @) (8.46b)

is derived analogously to (8.46a). From (8.46), one derives

(A curly it ), curli T (%) — curly, 5 R))| = Ceh2 12, 1VeF QO [V )]

N

The same arguments, applied to the first term on the right-hand side in (8.44),
altogether leads to the estimate

‘(Axxcﬂﬁzﬁ (), curl,p (§)> _ (Axxc@m §). curl; ¢p (&))‘

< CJehZ bz, | Vey )| | Vri (v)]] -

T2

For the term <AXXCGH2L7 ¥, curl;p (f()>, we apply (8.46) twice to obtain

(A curloi ). curli¥ ()| < Ch2 12, 905 (O IVri )]

T2
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3. Estimate of (the difference in) the second part of the sesquilinear forms (8.43)
The estimate of the difference

A i= (eurlit ) w1 () g1 B) 5 R) — (curlz,eft (). wie () 816 0T %)

requires us to investigate corresponding quantities in both terms and their differ-
ences:

(a) Asin (8.45) and (8.46) we get
|eurloa ) - curlo i @) | < Ik, 1 Vri W)

[t a @) = 2 1vri Il Jeba @) < 2, 1vra -

(b) The definition of the vector wy [cf. (8.42)], directly implies that
[lwi R <C. [wie®|<C. |wi® —wie®| =Cny,

where n? is asin (8.31) and C depends only on the coefficients A and b.
(c) Itremains to consider the surface element g1. From (8.40b) we conclude that

lg1 ®)| < ChZ,.
Recall the definition of ﬁeA as in (8.14). The difference can be estimated by

g1 %) — g1.0 ®)| = lpe ®) — 1] g1 ®)| < Cpih2,.

By combining these inequalities we obtain
A1 = € (Je+nf +Bf) W2 B, | Vet )] 7 ()]

. . N TR .
Since the function || X X) — X, () || is integrable there exists a constant such
that

1 1
/ - —dxdy < Ch7hy’ ————dsydsy.
txt 47 | xry R) = Xz () fixty 4 X~ |

In summary, we have estimated

bey o (1, V) — 511,12 (i, ‘V’)’ = C/_)% (SZ +de+ Jo + n? + ,5?)

X/ Ve ()| UVey )|+ [V x)])
T X1 4 ”X - y”

dsydsy.
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Let b (-,-) := Zf],%zeé br, 1, (+,+) and define 5( -) analogously. A triangle
inequality leads to

b (i, v) — b (i, )

fCﬁ%(S(%-d{%-Jz-l-ﬂ?*l—ﬁ(A)

/ [Vea I AVey ®)[ + [V (x))
T'xT 4 x -yl

dsydsy.

Our assumption Sy C H! (I') implies that the functions || Vri (-)|| and || Vry ()| +
|V (-)| are in L2 (T"). From the continuity of the single layer potential we obtain

b (i1, %) — b (i1, V)

< C37 (e + de+ Je + i + 5 ) il g1 oy 19 sy -
(8.47)
The combination of (8.41) and (8.47) yields the estimate of the perturbation e,

le2 . ¥)] = C (de +ec +nf + 27 (o0 + de + Jo + 5 + )
2l g1 oy IVl 12y (8.48a)

fors =0,1/2.

The estimates of the perturbations e and e3 are based on the Lz-continuity of the
single layer potential. Lemma 8.2.4 and an inverse inequality imply for s = 0,1/2
that

. A v v “Ay—1/2—5 v v
lex @@, ¥)| < Cpf il gy Wy < Cagthy >~ il s ey ¥ sy -
(8.48b)
In a similar fashion one proves that
les @ 9)| = Cpepphy 7 il sy ¥ g1 2qry - (8.48¢)
The assertion follows from (8.48). O

8.3 Overview of the Orders of the p-Parametric
Surface Approximations

In the previous section, we have analyzed the perturbations which are introduced
by the p-parametric surface approximation. The errors are expressed in terms of
geometric quantities. In Sect. 8.4, we will estimate these geometric perturbations
by using elementary tools of differential geometry. Here, we will summarize these
results and combine them with the perturbation analysis of the previous section to
derive conditions for the orders of the p-parametric surface approximation such that
the optimal convergence rates of the original Galerkin method are preserved.

First, we introduce the appropriate notion of smoothness of the surface I.
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Definition 8.3.1. The mapping P in (8.12) belongs to the class A7 if there is a
neighborhood Ut of I" such that P : Ur — T is Lipschitz continuous and:

1. I'? C Ur.
2. P|pp : T'? — T is bi-Lipschitz continuous:

cplx—yl <P x)—P Y| <cp' |x—yl vx,y € I'7.
3. For any © € Gfine and ¢ = P (1), the restriction Pl,:t —> tTisaC™
diffeomorphism for some m > 1.

A mapping P € AT belongs to A" if I' € C 2 and if Condition 2 can be
replaced by
Plpp : T? — T is a C'-diffeomorphism.

For the error analysis, we assume that y is as in (8.12) and that the mapping P
satisfies Assumptions 8.1.3, resp. 8.1.6. If P : Ur — I' is m times differentiable
the quantity

Crm := max sup [|[0%P (x)|| (8.49)

aeNg xeUr
loe|<m

is well defined. We distinguish between the following two cases

P belongs to A;"W form >k + 2, (8.50a)
P belongs to A™ for m > k + 2 and is chosen as the conormal projection,
(8.50b)

where k denotes the algebraic polynomial degree of the finite element space (cf.
Definition 8.1.12).

In Sect. 8.4, we will prove that, for the p-parametric surface approximation of
degree p, the quantities dy, dy, ... can be estimated from above by Chz, where the
corresponding values of ¢ are listed in Table 8.1. Hence the perturbations in the
sesquilinear forms can be estimated by using Corollaries 8.2.6, 8.2.9, 8.2.10 and
Lemma 8.2.11.

Exemplarily, we discuss the integral equation for the single layer potential [cf.
(4.9)]

Findg € H™'2() 1 (Vo.m) 2@y = (g0 M2y Ve H/2(D).
(8.51)
We assume that the coefficients A, b, ¢ are such that Assumption 8.2.1 is satis-
fied. We consider the discretization of (8.51) by (k, p)-boundary elements. Corol-
lary 8.2.6 implies that

b (@ ¥) — b @, 9)| < O > (e + do) 3+ B2} 1l - oy 19 =12
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Table 8.1 Convergence orders of geometric quantities which are related to the surface approxi-
mation

Case (8.50a) Case (8.50b)
b=20 b#0 b=20 b#0

Lem. 8.4.12 Lem. 8.4.12 Lem. 8.4.12 Lem. 8.4.12
@200 P o g3 P Cor. 8.4.13 P corsars P11 corgans
dy (820b) pLem.8.4.11 pLem. 8.4.11 pLem.8.4.11 pLem. 8.4.11
g (8.20b) p p p+1 P
o (8.14) 0Lem. 8.4.4 0 Lem. 8.4.4 0 Lem. 8.4.4 0 Lem. 8.4.4
ﬁlA (8.14) pCor. 84.7 p Cor. 8.4.7 p+1Lem.84.10 p+1Lem.8.4.10
nl (8.31)  p(8.95b) p (8.95b) p (8.95b) p (8.95b)
nIM (8.31) pLem.84.14 p Lem. 8.4.14 p Lem. 8.4.14 p Lem. 8.4.14
ni,831) p—1Lem. 8414 p—1Lem.84.14 p—1Lem 8414 p—1Lem. 84.14
J; (838)  p(8.71) p (8.71) p (871 p (8.71)

fors € {0,1/2}and all u,v € Sy. For the piecewise smooth case, i.e., Case (8.50a),
we obtain from Table 8.1

v v > v v —1/2— v v
b e 9) = by %) | = CHE™7 il =<y 19 12 -

Hence the sequences in (8.16) are given by ¢; = hf_l, 8§ = hf_l/z , and the
uniform stability follows for sufficiently large £ > £( from

‘1513 G, ﬁ)} < b (i1, 9)| + ‘b G, ¥) — by (i, v)} <C (1 + hg—‘) il =120y 19 =120y

by taking into account Assumption 8.2.1. If the boundary element space consists
of piecewise polynomials of degree k on a piecewise smooth surface, the optimal
choice of p is given by

p=k+2.

All other cases can be treated in an analogous way. Table 8.2 lists the values of
cg and 82, where s = 1/2 corresponds to ¢y and s = 0 to 8}3. Finally, Table 8.3 lists
the orders of the p-parametric surface approximation so that the convergence order
is as in the unperturbed case (up to, possibly, a logarithmic factor (1 4 log|k|).

To preserve the convergence rates of the perturbed Galerkin method with respect
to weaker norms or, e.g., field point evaluations, the order of the p-parametric sur-
face approximation has to chosen higher as for the energy norm. The error due to the
geometric perturbation has to be in balance with the convergence order of the unper-
turbed Galerkin method. For field point evaluations, the convergence rates are twice
as high as the rates with respect to the energy norm provided the problem is suffi-
ciently regular (cf. Sect.4.2.5.1), |u (x) — uy (x)| < Ch?k+2721 for any x € Q. The
constant C is independent of the mesh width but, possibly, depends on x. Table 8.4
lists the required orders of the p-parametric approximation to preserve these higher
convergence rates.
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Table 8.2 Values of ¢, and § Z in the Strang Lemma (cf. Remark 8.2.3) where s = 1/2 corresponds
tocgands =0to ]

Operator Case (8.50a) Case (8.50b)

b=0 b#0 b=0 b#0
% Chg;fl/zfx Chg;fl/zfx Ch£p+1/27x Ch[p*l/zfx
K Chl (1+ |loghe|)  ChY (1 + |loghe)  ChY (1 + |loghe|)  ChY (1 + |log he|)
K’ Chl (1+ |loghe|)  ChY (14 |loghe)  ChY (1 + |loghe)  ChY (1 + |log i)
W chl P ch? ™'\ Ch! Ch!

Table 8.3 Required orders p of the p-parametric surface approximation so that the overall
convergence rates are preserved (up to, possibly, a logarithmic factor (1 + log |1]))

Operator Case (8.50a) Case (8.50b)

b=20 b #0 b=20 b #0
Vv p=k+2 p=k+2 p=k+1 p=k+2
K p=k+1 p=k+1 p=k+1 p=k+1
K’ p=k+1 p=k+1 p=k+1 p=k+1
w p=k+1 p=k+1 p=k+1 p=k+1

Table 8.4 Required orders p of the p-parametric surface approximation so that the overall
convergence rates with respect to field point evaluations are preserved

Operator Case (8.50a) Case (8.50b)

b=20 b#0 b=20 b#0
Vv p=2k+4 p=2k+4 p=2k+3 p=2k+4
K p=2k+2 p=2k+2 p=2k+2 p=2k+2
K’ p=2k+2 p=2k+2 p=2k+2 p=2k+2
w p=2k+2 p=2k+2 p=2k+1 p=2k+1

8.4 Elementary Differential Geometry

The convergence analysis of boundary element methods with p-parametric surface
approximation requires some estimates for dy, dy, £¢ in (8.20) which, in turn, require
the approximation of the normal vector, the surface element, and the kernel function.
In this section, we will develop these results from basic calculus. We avoid the use
of the intrinsic calculus of differential geometry but employ the parametrizations
which are also used for the numerical realization of boundary element methods.

Some of the results in this section go back to [167]. Further papers on this topic
are [168], [80, Chap. XIII, Sect. 2], [84], [21], [63, Sect. 1.4].

Recall that G denotes the boundary element mesh on the original surface I" and
G*fine ig the corresponding affine surface mesh. The p-parametric surface mesh
is GP. For t € Gfire the lifted panel in G? is denoted by 7 = lift; , (7) (cf.

Notation 8.1.7) and the corresponding panel in G by T = P (T) = y. (1), where

Yr=Pojyp:7T—>r1. (8.52)
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For the convergence analysis, we consider a sequence of meshes ngﬁne, g;’ y... (cf.
Sect. 4 and Notation 8.1.15), while we skip the index £ here for ease of notation.
Throughout this section we assume that Assumption 8.1.16 is satisfied.

Let v € G and ¥ = lift, (r) € G. Recall that y, , = 17 (P o x2™*), while
the pullback of 7 is given by y; = P o y ,.We will apply the interpolation error
estimates as derived in Sect. 4.3.

Lemma 8.4.1. Let P in (8.52) belong to the class Aé)\j_l (cf. Definition 8.3.1) for
some p > 1. Then, for 1 <i <3anda € Ng with || < p, we have

[P o ten = e leogy = Colrpniht™, (853
[0% (P o xe.p = Xe.0)ill cozy = CrCrprah? ™, (8.53b)
where Cy, C1 depend only on p and Cr,p11 is as in (8.49).

Proof. We have y., = 1» (P o Xafﬁ“e) For any nodal point /ﬁgji-), we have
Aop (Pg%) € T and thus xr,, = 17 (P © xz,,). This leads to

(POXr,p er) X = (POXr,p_Tp (POXr,p))l_ (X)

and we may apply standard interpolation estimates to bound the right-hand side and
its derivatives.
Fix 1 < i < 3 and write f), := (P o xz,p); 1esp. 7, := (Xz,p),- Note that

177 » = Np. Let Tp (71p) denote the p-th order Taylor expansion of 17, about the
barycenter M of 7. Then

ﬁp —p = (ﬁp =T, (ﬁp))"‘(Tp (ﬁp) _/I\Pﬁp) = (ﬁp =T, (ﬁp))+7p (Tp (ﬁp) - ﬁp)'

This leads to

co@) - 854

lio = lency = (14 (7] oy ooy ) 175 i) =

Standard error estimates for two-dimensional Taylor expansions lead to

1
Ty - H 3] 3P+1—j v
H (’lp) 77pnc0() ~(p+ 1) 0<j<p+1 C()O
In Lemma 8.4.2, we will prove that
max H8j8p+1_J Mp < ChPt1,
0<j<p+1 co(z) —

where C depends only on p and Cr,p41.
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It remains to estimate the first factor in (8.54). For any w € C° (?), let

Wp = 1?7 (w). The coefficient vector of wp with respect to the nodal basis is
denoted by w,. We argue as in the proof of Corollary 4.4.6 to obtain

Theorem 2.5.4 Lemma 4.3.1 ,
wolcogy = Clwollarrray = C'lwolp

B2 Wl S C Wl < C Moy ®59)

where C” depends only on p.
For the estimate of the derivatives (8.53b), we employ

9 ('711 - 'lp) = {8a (ﬁp —Tp ('711)) + 0% (Tp (ﬁp) _Tpﬁp)}
= (B“ﬁp —9*Tp ('711)) + 917 (Tp (ﬁp) - ’717) :

The inverse inequality (cf. Theorem 4.4.2), applied to the reference element 7,
results in

~ (8.55) ~
[0iwolco@) = Cinv [Wolcogy = CinC" IWlcogs) (8.56)
and a recursive application of the first estimate in (8.56) yields
[*wp | o) = CinC” Iwlcoge)-

The Taylor expansion commutes with the derivatives, more precisely, 0% T (7] p) =
Tp—|a| (8" ﬁp), where formally, we set Ty (f) = 0if k < 0. Thus we obtain

A < o > o > < ol 1% C-
0% i = 1) ] = (03 = Tyia (9°0,) )] + (ConC") ! BT @)™

< C1CF,p+1hf+l,

where C; depends only on p. O

Lemma 8.4.2. Let p > 1 and let P in (8.52) belong to the class AIP‘W for some k.
For any ju € NG with || = k>

10 220 | cogz) < Cranh’. (8.57a)

2 Note that, for k > p and |u| = k, the derivatives 8"y, , vanish and the right-hand side in
(8.57a) may even be replaced by 0.
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where Cyap depends only on p, k, and Cr . The derivatives of the pullback y, =
P oy p satisfy
18 xell cozy < Cunh (8.57b)

where gstab depends only on p, k, and Cr.

Proof. First, we will prove (8.57b) for the case p = 1, i.e., yr,p = x2. The
mapping x2" has the form

aﬂme (X) Bri + br

with some B; € R3*? and b, € R3. The columns of B; are denoted by a;, a, € R3.
As in the proof of Lemma 4.3.6, we derive

GH (Pz o)(afﬁne _ Z Z /3' ‘ 135 (aﬂ-i—vPi) OX?:fﬁne'

BeN3 veN
[Bl=p1 [v|=p2

Next, we employ |(B,)I-, j| < h. and obtain

sup |94 (P; o x¢) ()| < Crx (3ho)¥, (8.58)

XET

where Cr is as in (8.49).

Next, we will prove (8.57a) for general p € N. The result is trivial for k > p
and we restrict to the case 0 < k < p. We use the same notation as in the previous
proof. (Recall that 1j; = P; o yf and ), = Tpﬁl.) We obtain

Onp = (T7in) = 9 (1 =17) (Temriis — i) + P00, (8:59)
where [ is the identity and, formally, we put 7_17; = 0. Observe that 0*

Tr—11m1 = 0. By taking norms on both sides in (8.59) and by using (8.58), we
obtain

[0"n, ||c00 ||3M711||co() + Yu 1 Tk—171 — m”C(’O + Cry (Bho)*
= Vel Te=17 = 7l coz) +2Crk (ho)*

where [cf. (8.56)]

04T 7w

H W Cco(%)

Y = sup
weCO(7)\{0} ||W||Co(§)

= (ainvc //)k .
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For the estimate of the error in the Taylor expansion, we employ (8.58) and get

C Cri
I Temritn =il oy < - Gho)*. (8.60)

The combination of these estimates proves assertion (8.57a).
Next, we will estimate the derivatives of the pullback y; = P o y , of a surface

panel T = lift; (1) € G for general p > 1 and employ Lemma 4.3.11 (with the
substitutions u <— P; and n <— x+,,). We obtain

1]

(@ip) = Y cp (9 Pi) o e
1Bl=1

where the coefficients cg are real linear combinations of the terms

18]

l_[akr (X7=P)nr ’

r=1

where, for 1 < r < |f|, the indices obey the relations 1 < n, < 3,4, € N03, and

Irﬂ1 |[Ar| = || By using (8.57a) we get

1B 1B
18" (tep),, B = [T (Coh!) < (Coaho)™!.

r=1 r=1

Thus the coefficients cg satisfy the same estimate (with a different constant C') and
we obtain
|(3"115) ®)| = Ch,

where C depends only on k, p, and Cr.

Corollary 8.4.3. The Gram matrices for x and yx,p satisfy

Vietr G- (R)| =CCPh2 and |Gep (R)

<CCfhZ.  (8.61)

Proof. Let t; (), t2 (X) denote the column vectors of J; (X). The Gram matrix can

be written in the form G, (%) = ((i,- ®.4 ®), 2). Lemma 8.4.2 implies that

(t: .t ®)| < onz.
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Hence the matrix norm

1G: B == max_[(G: () ;|

is bounded by Ch%. Since G; (X) is a 2 x 2 matrix and norms in finite-dimensional
spaces are equivalent the first assertion follows.
The proof of the estimate for G, , is analogous. O

For x¢p and y; = P o x¢ p, the surface elements g, and g , can be written in
the form

ge ®) = 91z ®) x Do)z R and  gep K) = 01 xz.p R) X D2)zp ®) -
Lemma 8.4.4. Let P in (8.52) belong to the class Aﬁj ! for some p > 1. Then, for
allx € 7,
|ge.p B) = ge ®)| = C2h2*2 and  [ge,, ®)] < C3h3. (8.62a)
For sufficiently small h, < h, we have the lower estimates
c3h? < |gep )| and 02 < |g: (). (8.62b)

The constants Ca, c3,¢3,C3 depend only on Cya, Cr,py1, and p while h may in
addition depend on the shape-regularity of the mesh [cf. (4.17)].

Proof. The reverse triangle inequality leads to

800 B) — &r R)] < |01 1 R) X D2 xr R) — D1 fe.p (K) X Do xep K|  (8.63)
< 01 (xe ®) = xr.p R)) X D2y ®)
+ |81 .0 R) X 92 (e K) = xr.p ®) |
=: 81+ Ss.

We start with the estimate of S, and employ (8.53) to obtain
S2 = 911z R 92 (r ®) = xep R = C1Crpaahy™ 911
The quantity d; y+,, can be estimated by means of Lemma 8.4.2
|01 x2.p || < Csavh. (8.64)
The combination of these estimates leads to
Sy < ChP*2, (8.65)

where C depend only on Cyp, Cr,p+1 and p. The estimate of Sy is just a repetition
of the previous arguments and is skipped here.
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The estimate of g, , from above follows from (8.64)

< C2 h2.

stab

|gr,p (f‘)| = ”81Xr,p (%) Haz)(r,p X)

For the estimate from below, we start with

gT,P X 2 gr X)| — gr _gr,p X

| (A)| | affine (A) |( affine ) (A)
= |g2fﬁne (’A‘)| - |(g3—fﬁ“e - gr) (’A‘)| - |(g7,— - gr,P) (§)|
> 2| -, (2 + WP

The shape-regularity of G¥f"® implies that
|_L,afﬁne| > Ch%,

where ¢ depends only on the shape-regularity of the mesh [cf. (4.17)]. Thus, for
sufficiently small i, < h, the first estimate in (8.62b) is proved.

The second one simply follows by combining the first estimates in (8.62a) and
(8.62b)

lgr X)] > |gr,p (f‘)| - |gr (x) — 8t,p (i)| = CShi - C2h$+2 = EBhi

for sufficiently small /. |

Next, we will transport estimates (8.53) to the surface. For this we have to intro-
duce some notation. Recall that, for r € G*fi"® the Jacobi matrices of Xz,p T€Sp.
Xz = P oy p are denoted by J,, resp. J; and the corresponding Gram matrices
by G, resp. G [cf. (8.13)].

Notation 8.4.5. Ler v € G gnd ¢ = lift, (7) € G. Forx € 1, let Ty be the
tangential plane to T at X which is spanned by* t; (X) = 9; xz (X), i = 1,2. Fora
tangential vector § € Ty, the Gdteaux derivative of some sufficiently smooth function
n: 1 — R3 is defined by

Dn(x) & := (D) ®) G;' ®)IT R) &, (8.66)

where ) = 10 yq.

Corollary 8.4.6. Let P in (8.52) belong to the class Aﬁ"j ! for some p > 1. For
T € Giine Jot ¢ = lift, (v) € G. If hy is sufficiently small hy < hq then, for any
xetandf €Ty,

16 (x) — x| < Coh?™!, (8.67a)
DO (x) & —&| < C4h? | &l (8.67b)

3 Convention: If x € ¥ € G and X € 7 appear in the same context, they are related by x = y, (%).
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where 0 is as in Remark 8.1.11. The constant 50 depends only on Cyyp, Cr,p+1,
and p, while C4 and hg > 0 may in addition depend on the shape-regularity of the
mesh [cf. (4.17)].

Proof. For v € G¥ire Jet ¢ = lift; (¢v) € é The first estimate follows from
(8.53a) by

sup |6z () = x[| = sup | xz,p ®) — xr ®)] < V3CoCr,p+1h2*".
XET

XET

We turn to the second estimate. Let I : R3 — R3 denote the identity. Then (8.66)
simplifies to*

DD ®E=J.®G'®ITR))E=E VEeTy andx =y (%).
(8.68)

Note that 0; = x,p 0 x7 ' so that 0, = Xe,p and (Dé,) (X) = Jr,p (X). Thus and
in view of (8.66) we derive

1D )& — €Il = |(Je = Je.p) B G R ITE - (8.69)
For a matrix-valued function A : 7 — R"™" A (X) = (a,-,j (f())lﬁ,-gm, we define
1<j<n
the norm
1Al := sup max |a;,; (%) (8.70)
~~1<i<m

X€ 1<j=n

Since all norms are equivalent in finite-dimensional spaces (the matrix dimensions
occurring in (8.69) are 3 x 2,2 x 2, and 2 x 3), there is a constant C > 0 such that

ID6: )€ — €l < C |(Fe = Tep) || |G 975 €N
(8.53b)

< CCiCrpr B2 |G| 375 1EN- (8.71)

B

The chain rule implies that

Jz (i) = (JP S Xt,p ()A()) Jr,p,
where J p is the 3 x 3 Jacobi matrix of P. By using Lemma 8.4.2 we obtain

|2

. < CCrh. (8.72)

It remains to estimate the inverse of the Gram matrix. We have

Gl= L [ Jia)” —(fl’fz)} _

Cos b)) b

* This can easily be seen by writing § = J,Z and inserting this into (8.68).
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Lemma 8.4.4 implies that
g (%) > EBhf

for sufficiently small /.. The estimate [cf. (8.72)]

(t ®).t; ®) < CCE h? (8.73)

leads to
|G = cne?. (8.74)
The combination of (8.71), (8.72), and (8.74) leads to the assertion. O

The following statement is a Corollary of Lemma 8.4.4 and applies for any suffi-
ciently smooth projection P : I'y — T. In the case that P is the orthogonal surface
projection, estimate (8.75) can be improved by one order (cf. Lemma 8.4.10).

Corollary 8.4.7. Let the Assumptions of Lemma 8.4.4 be satisfied. For sufficiently
small hy < h, we have

(gr,p o X;l) (%) _

< Zpp, (8.75)
gr o x7t (%) !

where h, C,, €3 are as in Lemma 8.4.4.

Proof. By using Lemma 8.4.4 we obtain

(gr.p © Xz_l) (X) —&:° Xz_l (X)
groxr' (%)

gr,p (ﬁ) — &t (ﬁ)
g (%)

(geporr)®
groxy' (x)

< sup
XeT

O

We will derive an estimate for the error in the approximation of tangential vectors
and surface elements under the assumption that P is the orthogonal resp. conormal
surface projection (cf. Example 8.1.8). We start by writing the ratio in (8.75) in
an alternative way. Note that the Gram matrix G, (X) = JI X) J; (X) € R>? is
symmetric and positive definite so that there exists a positive definite square root
Gi/z (%) € R?*2 such that G; (X) = G%/z (X) Gi/z (X). The inverse of Gi/z (X) is
denoted by G;l/ 2 (%).

Lemma 8.4.8. For any x € © € G, the ratio of the original surface element and its
p-parametric approximation satisfies

° -1
—(g;"’o - ()ng) = \Jdet (622 ®)Gep (965 ),

where X := x7! (x).
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Proof. The assertion follows from Exercise 8.4.9 and the multiplication theorem for
determinants of matrix products. O

Exercise 8.4.9. Foraj,a; € R3 and A = [a,a,] € R3*2,
det (ATA) = ||la; x a5 >.

Let t € G For any x € ¢ = lift; (r) € G and £ € T, we introduce the
deformed tangential vector by £ := D8, (x) £.

Lemma 8.4.10. Let P in (8.52) belong to the class AP*! for some p > 1 and
be chosen as the orthogonal surface projection (cf. Example 8.1.8). Let T =
lift; (r) € G for some v € G¥" gnd assume that hy < hg with ho as in
Corollary 8.4.6. Then, for all x € t,

(Eu&) -t s b alIGl Yab T @76

(grpoxs') ® _

1
g o x7' (x)

< Ceh?™1, (8.76b)

where Cs, Cg depend on 60, Cy4 as in Corollary 8.4.6.

Proof. For t € G4 letx € T = lift, () € G. The difference in (8.76a) is split
into

<§1,§2> —(€1.62) = <§1,§2 - §2> + <§1 - 517§2> + <§1 — &6 — §z>~ (8.77)

The estimate for the last term follows from Corollary 8.4.6

& —&] =100 06 — &l = Cu?

since2p > p + 1.

Next, we consider the first term on the right-hand side of (8.77). The vector
0r (X) — X = xr,p (X) — xr (X) is collinear to the normal vector n (x). Since, for
any y € R2, the vector J; (X) y € Ty, we have

(Xe.p ®) = 4z R), I R §) = 0.

Applying the Giteaux derivative in the direction of some Z € R? results in

((Jeop B) = Je (%)) 2.3 R §) + {xr.p ®) — 2 }) . DI (%) @) §)) = 0, (8.78)

where we employed the notation

2 2
DI R @) = > %, 1 R) € R,

k=1j=1
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Any £; € Ty can be written in the form & = J. (X)§ for some § € R2. Hence
(8.78) is equivalent to

((Jep ®) = Je R) 2.61) + (xr.p ®) = % ®). DI ®) (&) §)) = 0. (8.79)
By substituting & by J; (X) Z and 7 by 6; in (8.66), we derive
Jz,p X)z2=D0; (x) J: X)2).

Let & = J; (X) z. Then (8.79) can be written equivalently as

(&—&.61) = = (6: (0 —x. DI ) &) ).

The chain rule yields (with X = y; p (X))

3
00j (e ®); = Y OmnP) ® (0) (xr.p ®),,) (0 (xz.p ®)),,)

mmn=1

3
+ D O P) ) 0k (xep K),, -

m=1
Lemma 8.4.2 implies that
19%0; xe.p B = CZ,

where C depends on Cyyp and Crz. Since the dimension of the tensor DJ; (x) is
finite and equals 3 x 2 x 2, the equivalence of norms in finite-dimensional spaces
implies that there is a constant C > 0 such that

~ L (8.67a) ~ .
(&~ g2.8)| = Cn200: GO —xl 2N 10 <" T+ Yl 130

Finally, we employ

. NRT 1 ) .
[l = I ® ¥ = (G- ®)y.¥) "~ = CW Iyl = Che |yl -
o iz

The combination with the analogous estimate for & = J; (X) Z leads to

(& —&.a)| = Chzr il g

Repeating all arguments for the second term on the right-hand side in (8.77)
completes the proof of (8.76a).
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It remains to prove (8.76b). In view of Lemma 8.4.8, we consider
G;'?® G, OG?®) =T+E®X).

where I is the 2 x 2 identity matrix and E (x) := G; /> ) Gr,, }) G; "/* (%) — L
From the continuity of the determinant we conclude that

det(I+E) =1+ O (|E]), (8.80)

where ||-|| denotes the spectral norm of E. Since E is symmetric we have

|(v, Ev)| [(W. G, p R) W) — (W, G (X) w)|
|E[ = sup 5~ = sup -
ver2\{o} [IV[l weR2\{0} (W, Gz (X) w)
~12
(5
= sup ——>— = Chf“.
| eT, €1
§=D0.(x)§
Thus (8.76b) is proved. O

Next, we will investigate the difference of the distance ||x —y| between two
points on the original surface I" and the distance ||Xx — ¥|| between the corresponding
points on the approximate surface. Recall the definition of gr which measures the
ratio between the geodetic distance and the Euclidean distance of surface points [cf.
(4.80)].

Lemma 8.4.11. Let P in (8.52) belong to the class Aﬁ"jl for some p > 1. Let the
mesh width h be sufficiently small h < hgy with hgy as in Corollary 8.4.6. For any
x,y € I', we have

160 (x) =6 (y) — (x=y)l = C7h” [x —y] .
The constant C7 depends only on Cyyy, [cf. (8.57)], C4 as in Corollary 8.4.6, cp as
in Assumption 8.1.16, gr [cf. (4.80)] and the shape-regularity of the mesh.
Proof. First, we consider two points x,y € T = lift; (7) € G for some 7 € GAffine,
LetXx = y;'(x), ¥ = x7' (y). Fort € [0,1] we write Z (1) := § + ¢ (X —§) and
z(t) := y (Z(¢)). Then

Or (%) =0z () = (X =¥) = Yr.p X) = Yr.p (§) = (fr B) — )= ()

Vd ((xe.p — x<) @ 1 ) o
- /0 (03Y y )@@) , _ /0 Uy —1) GO) G dr.

Note that £ := J; (Z(¢)) (X — §) € T,) and, thus, we obtain

1
Oz (x) — 0 (Y)—(X—Y)=/O (DO (z (1)) § —§) dr. (8.81)



510 8 p-Parametric Surface Approximation

Estimate (8.67b) implies that
16 (x) — 6 (y) = (x = )| = Cah? €]l (8.82)
The norm of & can be estimated by [cf. (8.73)]
IEI7 = (R =9). G @(1) X —§) < CCE, A7 |R—F]7. (8.83)

Letx = y;(X) andy = y: (¥). By using the bi-Lipschitz continuity of P [cf.
Definition 8.3.1(2)] we get

Ix =yl = [P (xe.p ®) = P (xe.o D) = ¢p | 4.0 ®) = 2ep @] -

Taylor expansion of y.,, about y yields

e X)) = Yxep () =Jep §) X=§) + R(X,¥)
where

A2
|

Iy —x §
2

Lemma 8.4.2 ||§7 — )’Z”

X. V)| < o . < 2 70 2
IR G5 < ma [0 e lcoy S Can

This leads to
- 15 —%I”, -
Ix =yl = cp | |[Ir.p 3) @ =9)| — Coan —ht). (8.84)

For the first term on the right-hand side, we proceed with

13ep G &=9)|* = R—§.Grp §) X —F)).

The inverse of the Gram matrix has the form

G-l = 1 ”82)(7:,11”2 _(81)(,,1,,32%(1,1,)
T.p g%,p _(aer,pvaer,p) ”81){1,1,"

The combination of (8.62b) and (8.57a) leads to

stab

C A~ A A
s <C )2 and “Jr,p -y ”
3%t

SO S VIS L S
el Voo
T

Tplz

|62,

yll-
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Inserting this into (8.84) results in

A A c3he Cstab 2
%=l = cp R - §] (— _ G, )
VTl 2

For sufficiently small /; we have proved that
ly —x|| > cshe Iy —X]|, (8.85)

where cg > 0 depends on Cyyp, c3 and the shape-regularity of the mesh.
The combination of (8.1) and (8.82)—(8.85) leads to

16z (%) = 6z (¥) = (x = Y)|| < CCaCrah?* ! X = || < Coh? |x—y|| (8.86)

with Cy := (CC4CF,1Cafﬁ"e) /Cs.

Next, consider some X,y € I', X # y, and choose a paths :={s (¢) : t € [0, 1]} €
C%1([0,1],T) of minimal geodesic length, which connects y and x and satisfies
y = 5 (0) and x = 5 (1). Let (fk)zzl denote a minimal sequence of triangles in G
such that

q
s={s(0):re0.1)} c | J%&-

k=1

Choose a minimal number of points
O=to<thi <...<ty =1
such thats; := {s(¢) : 0 <¢ <11} and
V2<j<m sji={s(t):tj_1 <t <t;}
define a disjoint partitioning of s which satisfies
Vi<j<q 3=<k(j)<q s;Cugy-
Let |s| denote the length of s while the length of s; is called |s;|. Then
m
106) =60 = &=l = D |br0) (@) = b (2/21) = (@) 21|
Jj=1 . i
<Co Y hP|zj—zj 1| < Coh? Y |s;| < Cls| h”

j=1 j=1

(4.80)
< Cogrh?|x—y].
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Lemma 8.4.12. Let P in (8.52) belong to the class Aﬁjl for some p > 1. Let
the mesh width h of G be sufficiently small hy < hy, where hy > 0 depends on
hg as in Corollary 8.4.6 and C7 as in Lemma 8.4.11. For any o € R, there exist
C10, C11 > O such that, for any x,y € T', we have

116 (x) =8 W% — IIx—yI*| < Croh? Ix—y|*. (8.87a)

If P € APYl s chosen as the orthonormal projection (cf. Exercise 8.1.8) the
estimate can be improved by one order of h

16 =0 @I~ x=y[* < Cuh?* ! |x —y||*. (8.87b)

The constants C1¢ depends only on C7 while C11 depends on 50, C7, hy, and the
constant C as in Lemma 2.2.14.

Proof. The function py : R3\ {0} — R, p, (x) := ||x||* is infinitely differentiable.
Let further
q()=x+1(0 X -x)-F+10F —-y).

‘We obtain
o o : d
1060 =0 I = lx =31 = [ Zopo @@ as
1
- /0 tPas (1) (1), 6 (x) — x— (8 (¥) — y)) dr.

The norm of q can be estimated by using Lemma 8.4.11.

la@®l=lIx—y+t (@ -0y —x—y)Il > [x=y|| —tC7h? [x—y]|
> (1 =Ch?)|Ix—y]. (8.88)

Analogously, the estimate ||q (#)|| < (1 + C7h?)||x —y| is derived. Hence, for
sufficiently small 2 < hy, we have

SIx=yI < la@l =5 Ix =yl and lapa (@) = iz x—y[ 2,
(8.89)
where Cj, depends only on o € R.
The combination of the left estimate in (8.89) and Lemma 8.4.11 leads to

A

Q) .0 —x— 0@ -y < la@] 10 ® -6 — x|
%ahl’ Ix— 2. (8.90)

A

Hence (8.87a) follows from (8.89) and (8.90).
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If P € AP*! s the orthonormal surface projection the estimate can be improved.
We write

(@@).0x)—x—=(O ¥ -y)=&-y.0®)—-x-(0F) V)
+f ) -x=@@-YI*. @D

The second term on the right-hand side can be estimated by using Lemma 8.4.11
160 —x= (0 ) —YI* = C7h*7 [x—y[” = Cish” ! x—y|*.  (8.92)

where C13 depends only on /7 and C;. For the first term in (8.91), we employ
0(z) —z==x|z— 6 (z)|]|n(z) for z € {x,y}. Thus

|(x=y.0 (%) =x—= (0 (y) =y = 16 %) —x[| [(x—y.n(x))]
+ 10 ) —yllx—y.nm)I.

The combination of Lemma 2.2.14 and (8.67a) leads to
|(x = .0 () =x— (0 () =) <2CCohZ™" |x -y,

where C is the constant as in Lemma 2.2.14. O

For anisotropic problems, where the principal part of L is given by —div
(A grad u) with some positive definite A # I, the fundamental solution G [cf. (3.3)]

contains the anisotropic distance ||-||, = (-, -)L/ 2 where
(w,v), == (A, v).

In this case, the following corollary of Lemma 8.4.12 will be employed for the error
estimates.

Corollary 8.4.13. Let the assumptions of Lemma 8.4.12 be satisfied. For any a € R
and x,y € I', we have

16 ) =6 W13 = Ix = yI§| < Croh? x—y]|*. (8.93a)

If P € APT1 s chosen as the conormal projection (cf. Exercise 8.1.8) the estimate
can be improved by one order of h

16 ) =0 WIS = Ix—yli| < Coh?” x—y]|*. (8.93b)

The constants 510 (resp. 511) depend only on ca, Ca [cf. (8.19)], and Cyg (resp.
Cu).

Proof. Instead of the function p,, as in the proof of Lemma 8.4.12 we employ py :
R3\ {0} — R, pq (x) := |x||. By repeating all steps of the previous proof we
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derive

1
16 (x) =6 W3 — Ix—yla :/o @ Pa—2 (q (1)) (q (1) .6 (x) —x = (6 (y) —¥)), dt.

The equivalence of norms [cf. (8.19)] implies that

Pa—2(z) < Crapa—2(z),
g (1), 0 (x) —x— (O () —y)al < Clla@] 10 x) =0 () — x—y)|.

where C14 depends only on ¢y, Ca, and «. We use (8.88)—(8.90) to obtain

3C§C7C12C14
2

16.x) =0 W3~ IIx=yli| < h? lx —y[|*.

If P € AT is the conormal surface projection the estimate can be improved.
We write

(@0, 0x) —x—(OF) =&y 0 —x—(OF -y
+10®) —x— @@y -Ylx. (899

The second term on the right-hand side can be estimated by using (8.92)
16 () —x— (6 (y) =W} = CaCush?*! |x—y]>.

For the first term in (8.94), we employ 6 (z) —z = + ||z — 6 (z)|| v (z) for z € {x,y}
with the conormal vector v (z) = An (z). Taking into account the definition of the
(-, )o we derive

[(x=y.0(x) —x— (0 (y) —y)al = [(&) [x— 0 ®)|| (x—y.n(x))
— @) ly-0 @I {x—y.n(y)
<16 ®) — x| [(x—y.n (x))|
+ 160 @ -yl l(x—y.nm)
<2CCoh?*! x—y|*.

O

In order to analyze the perturbations for the kernel of the double layer potential
and its adjoint, we will use the following lemma.

Lemma 8.4.14. Let the assumptions of Lemma 8.4.12 be satisfied. Then

Vx.yer=lift, (1) €G: |mx).y—x)—(n (®),§—%)| < Cah?" [ly — x]*.
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For any pair of non-identical panels t1, T2 € GY" and x € ¥ = lifty, (11),
y € 1 = lift (t2) we have

I(n(x),y —x) — (ng %),y —X)| < Cish? [ly —x|.
where C14 and Cy15 depend on cg, Cgup, &mb, Cr.p+1, Ca, ¢3, p, and the shape-

regularity of the mesh.

Proof. First, we will consider the case x,y € ¥ = lift; (r) € G for some 7 € Gaffine,

Let X = 6 (x) and § = 0 (y). Taylor expansion on the reference triangle about X
leads to (cf. (5.3) and Definition 5.1.2)

.y —x) = (g ®.§-%) = 0@ 1§ — 1z ®) — (g @ xr.p @) — xz.p ®)

=< >Z<_Xv> 1 ®

+ Rl (ﬁ’ y)>

(1-59) rep®

<n5(x) Z i : +R2(ﬁ,9)>-

Because <§f —X, @> xr (X) = J; X) (§ —X) € Ty, the term k = 1 in the first sum

vanishes and the same holds for the second sum and the summand withindex k = 1.
Thus

o (i -%9) 1
(n(x),y=%) = (e (®),§ %) = (n(x) —ne ®), Z o

k=2
+ (n(x). Ry (x.¥)) — (n¢ (%), Rz (X.¥))

y—xV (Xr(ﬁ)_)(r, (i))
<n€(x) Z< > Kl p >

We will estimate the various quantities in the above expression in the following.

Estimate of R, R,:
Since R;, R, are the remainders of the p-th order Taylor expansion, we obtain as
in (8.60)

he |y — % p+1
IRy %9 + R (x,y) < ¢ Bel¥=2D77

(p+ 1!
689 C fy—=x|"" _~
= <C|y—=x||“h?~", (8.95a
Sy S C Iy xIPRET 950

8

where C depends only on p, cg, Csup, ﬁslab, and Cr,p 1.
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Estimate of n — n;:

Next, we consider the difference of the normal vectors and derive, from
Lemma 8.4.4 and its proof, the estimate

b ®) xR 1 &) xip (X
8t (f‘) 8t,p (i)
gr,p (X) & (%) n®) ’
gr.p (X)
[t (®) x t2 ®) —tp1 () x tro R
8t,p (’A‘)

In(x) —ng X)[| =

<

L

<Ch?, (8.95b)

where C depends only on C; and c3.
Estimate of derivatives of the pullback y.:

We employ estimate (8.57b) and (8.85) to derive, for k > 2,

(i-29) r®

| o
k! = 2 i G- R e ®) = Clhel§ =KD = Clly —xI?,
. aEN(Z, ’
la|=k
(8.95¢)

where C depends on ﬁsmb, cg, and k.
Estimate of derivatives of the p-parametric approximation error:
By using (8.53b), we obtain

(7 - 9) (e ®) = 10 )
k!

A ~nk —
< CiCrp hZ|[§ =R < ChE™! |ly — x|,

(8.95d)
where C depends only on p and Cr,p41.

The combination of estimates (8.95) with some Cauchy—Schwarz inequalities
leads to

|(n(x).y—x)— (ny (%).§—X)| = Ch2" [y —x|*.
We turn now to the case that x € 7y = lifty, (r1) and y € 7, = lift,, (2) for
some non-identical 7y, 7o € G*" Lemma 8.4.11 and (8.95b) imply that

[(n(x).y—x)—(n;(X),y—%)| = [(n(x) —ng (X) .y —x)+(n; X) .y —x— (§ —X))|
< Cish? |ly —x]|,

where C depends on the constant in (8.95b) and C.



Chapter 9
A Posteriori Error Estimation

The error analysis for the Galerkin discretization exhibits the asymptotic conver-
gence rates for the boundary element method which depend on the regularity of the
underlying integral equation. These estimates are called a priori estimates because
they hold for large classes of problems which are characterized by their regular-
ity. They are important because they show the asymprotic quality of the Galerkin
boundary method. However, for a concrete problem these estimates could be by far
too pessimistic and do not allow answers to the following questions:

o Isthe size of the error uy —u with respect to some norm or to some other measure
below some given error tolerance &?

e If the numerical solution uy € Sy is not accurate enough, what is a good strategy
to enrich the space Sy in a problem-oriented way? Is the uniform refinement as
described in Remark 4.1.8 a good strategy?

The a posteriori error estimation uses the computed numerical solution u; and
the given data (such as the right-hand side or the integral operator) and computes
non-negative indicators (1;)_, which have the property that the (weighted) sum
is an upper bound for the true error. The quantities will be local in the sense that
their computation involves integrals over small patches w; C I' and their number n
depends linearly on the number of panels.

Furthermore, the size of these local quantities can be used directly to detect sub-
regions on the surface I' where the error is large and which should then be locally
refined.

The development of a posteriori error estimation for finite element discretizations
of partial differential equations started with the pioneering papers [10, 11]. Since
then the number of publications in this field has grown enormously and we refer
to the monographs [2, 12, 14, 172,232] for a thorough treatment of this topic and
further references.

However, for boundary element methods, the nonlocal character of the integral
operator and the nonlocal fractional Sobolev norms cause difficulties in the mathe-
matical derivation of local error indicators and much fewer authors have investigated
local a posteriori error estimates for integral equations [47,48,50-53, 89,90,92,93,
189, 196,209,210, 240, 244].

S.A. Sauter and C. Schwab, Boundary Element Methods, Springer Series 517
in Computational Mathematics 39, DOI 10.1007/978-3-540-68093-2_9,
© Springer-Verlag Berlin Heidelberg 2011
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In this chapter, we will develop and analyze a posteriori error estimators for
boundary integral operators. We will follow the approach and the analysis as
introduced in [89, 90, 92].

9.1 Preliminaries

In Chap.4 we introduced the Galerkin boundary element method for the abstract
variational problem: For given F € H’, find u € H such that

a,v)=F () VveH. 9.1

Let A : H — H'’ denote the operator associated with the sesquilinear form a (-, -)
(cf. Lemma 2.1.38). Throughout this chapter we will assume that the operator A
is either of negative order and maps into H* (I") for some positive s or is of non-
negative order. Note that we always require throughout this chapter that the range
for the differentiability indices s in H® (I") obeys condition (2.84) depending on the
smoothness of I". A first assumption on the operator A is stated next.

Assumption 9.1.1. A : H5(I') — H™°(I") is an isomorphism for some order
2s € R, i.e., there exist constants C1, Co > 0 such that

Al zr—s (ryprsqry < C1 - and | A7 ”H~V(F)<—H—‘(F) = (.

The boundary element space S is composed by local polynomials which are
lifted to the surface I' via local charts and put together either in a continuous or
discontinuous way. The Galerkin discretization is given by seeking us € S such
that

a(us,v)y =F () Vv eS. 9.2)

The boundary element mesh is denoted by G consisting of surface panels t
(cf. Chap. 4).

Typically, the error u — ug will not be distributed uniformly over the surface I,
and adaptive refinement aims at refining the mesh in regions where the error is larger
than some threshold. In this chapter, we will introduce local a posteriori refinement
indicators for the detection of such regions (and for the estimation of the total error).
In this light, the goal of this chapter is to define computable quantities n; which will
depend on the discrete solution ug such that the estimates

n n
Cerr Y 17 < llus — ulfsry < Ceat D07 9.3)
i=1 i=1

hold. The upper estimate is called “reliability” because it guarantees a prescribed
given accuracy while the lower estimate is called “efficiency” because it implies
that the qualitative behavior of the error is reflected by the error indicators and not
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overestimated in an unspecified way. The quantities 7; will be local in the sense that
their computation involves integrals over small patches w; C I'. The number n in
(9.3) will depend linearly on the number of panels in G.

Remark 9.1.2. The size of the constant C is important for the practical use of
a posteriori error estimation. In order to guarantee a prescribed accuracy for the
energy error |us — ul| gs(ry one has to refine the discretization as long as the upper

bound (Crel Z?:l 771_2)1/2 is below the given threshold. In this light, we will track the
dependence of Cy| on more elementary constants as clearly as possible.

The adaptive solution of the problem (9.1) is structured in the following abstract
way. Let ¢ > 0 be a given tolerance for the energy error |lus — ul| gsr) and let
8 € (0,1) be a control parameter for the refinement. Let Gy be a coarse surface
mesh and let Sy denote the corresponding boundary element space.

Algorithm 9.1.3 (Adaptive Refinement).
begin
if £ = 0 then compute the solution ug of problem (9.2) for S = So;
1: compute the error indicators n;, 1 <i < ny;
if >.7_ n? < & then STOP: Solution is ug;

else begin
=4+ 1;
refine all panels T € Gy witht C w; and n; > § max nj; 9.4)
<jsn
subdivide (if necessary) further panels © € Gy_1 such that the mesh G
(9.5a)
becomes regular (cf. Definition 4.1.4); (9.5b)

solve problem (9.2) for S = Sy,
where Sy corresponds to the new mesh Gy;

goto 1;

end;
end;

The realization of the algorithm requires some mesh refinement techniques and
we will present some basic principles in the sequel.

We assume that a coarse mesh Gy is given. This initial mesh is used to generate
finer ones (g[)ﬁ':’{ in a recursive way by applying different refinement patterns.
For triangles, there exist various refinement patterns, some of them are depicted in
Fig.9.1.

If discontinuous boundary elements are employed the mesh G is not required to
be regular (cf. Definition 4.1.4). In this case, step (9.4) in the adaptive algorithm is
realized by refining all panels which satisfy n; < § max;eg 1; by the red refinement

pattern and skip step (9.5).
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&y
=

- lgree“(i) white

Fig. 9.1 Different refinement patterns for triangles. Red: Subdivision into four concruent triangles,
Green (i): Connecting the i-th vertex with the midpoint of the i-th edge, White: No refinement

red

%Igrm %

Fig. 9.2 Red refinement of a panel, typically, results in a hanging node (here marked by filled
square). Connecting this node with the opposite vertex of the neighboring panel results in a regular
mesh

If continuous boundary elements are employed the mesh G must be regular. In
particular, hanging nodes have to be avoided which typically arise if some panels
are refined by the red pattern. A panel vertex is called a hanging node if it lies in the
interior of an edge of some other panel. A typical situation is depicted in Fig.9.2.

The green closure algorithm refines some further panels so that the resulting
mesh becomes regular. It uses a function “mark™ which contains the refinement
patterns for the panels in G;—; and is initialized by mark (r) = “white” for all
7 € Gy—1. Hence it is straightforward to check from the function mark (-) whether a
mesh, which would result by refining Gy according to mark (-), is regular or not.
We set the function regular (Gy—1, mark) = “true” in the first case and “false” for
the other case.

The green closure algorithm is realized by replacing steps (9.4) and (9.5) by the
following piece of code.
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for all panels T € Gy with: t C w; and n; > 6  max n; forsome 1 <i <ndo
=j=m

mark (1) := red;
while regular (G,—, mark) = false do
for all T € Gy—; do begin
if mark () = green At contains one additional hanging node then mark () := red;
elseif mark () = white then begin
if T contains more than one hanging node then mark () := red;
elseif T contains one hanging node then mark (t) := green;
end;
end;

Remark 9.1.4. In the literature, there exist many advanced versions of the green
closure algorithm (see, e.g., [17] and the update [18]), which, e.g., use a larger
class of refinement patterns or guarantee that the shape-regularity of the panels is
preserved through the refinement process.

The efficient algorithmic realization of the refinement algorithm requires appro-
priate data structures for the mesh handling. We refer, e.g., to [17] and the update
[18] for the details.

9.2 Local Error Indicators and A Posteriori Error Estimators

The definition of local error indicators and a posteriori error estimators for operators
of negative order will differ from those of non-negative order.

9.2.1 Operators of Negative Order

We start with the case that the operator A : H* (I') — H ~° (I") which is associated
with the sesquilinear form « (-, -) in (9.1) is of negative order 2s € [—4,0] and, in
addition, s has to satisfy condition (2.84) depending on the smoothness of I'. Note
that the boundary integral operator V for the single layer potential for the Laplacian
satisfies this condition for 2s = —1 (cf. Theorem 3.1.16).

Let u denote the exact solution to problem (9.1) while the Galerkin solution ug
is the solution of (9.2). Our goal is to estimate the Galerkin error

e=us—u
by computable local error indicators. The image of the error under A is denoted as

the residual
r:=Ae =Aus — F € H* (T).
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The continuity (cf. Assumption 9.1.1) of A and A~! leads to the estimates
Cr AV -5y < IVl Tsy < G 1 AVIG—sqry  Yv € H (D).

The choice v = e shows that the Galerkin error is bounded from below and from
above in terms of the residual

- 2 2 2
c? Il z-say = llellzsay < o5y 71125 () Vve H* (T).

We will show in Sect. 9.3 that the norm of the residuals can be localized under very
mild assumptions on the mesh.

Let Z denote the set of counting indices for the basis functions b;, i € Z. The
nodal point associated with b; is denoted by z; € I". For any i € Z, we introduce
panel neighborhoods w; about z; and, for any t € G, neighborhoods w, about t by

w; =suppb; and w;:= U t. 9.6)

teg
INTH#Y

The distance of a panel t from I'\w, is denoted by
dy := dist (7, MN\wy). 9.7

The definition of the local error indicators will be based on the explicit representa-
tion of the seminorm || g (4, for non-integers o > 0:

0150 @) = Z/

a=|o] ¥

oz _ qa 2
/ |0%p (x) — 0% (y)] dsydsy,

Ix — >t

where 0 = |0 ] + A. The surface derivatives 0%¢ are defined via local pullbacks
to two-dimensional parameter domains as in (2.85). Recall that the range of o is
restricted depending on the smoothness of the surface [cf. (2.84)].

Definition 9.2.1. Let ug denote the Galerkin solution to problem (9.2) and let the
residual be given by
r = Aus — F.

The local error indicators are given by

7]1' = |r|Hfs(wi) l EI

n= |y n
I1€T

and the global error estimator is
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9.2.2 Operators of Non-negative Order

If the operator A : H® (I') — H~° (I') which is associated with the sesquilinear
form in (9.1) is an isomorphism of non-negative order 2s > 0, the residual

r=Aus — F € H°(I')

is a functional. In this light, the operator A acts as a differential operator in a broader
sense. For this case, we will derive error indicators which are of residual type. For
partial differential equations this type of error estimators goes back to the pioneering
papers [10, 11]. For integral equations they have been developed in [89].

Definition 9.2.2. Let (b;); s denote the basis of the boundary element space. The
Galerkin solution is denoted by ug, the exact solution by u, and the corresponding
error by e = ugs — u. For i € T, the local error indicators are given by

. la (e, biv)]|
ni = sup ———. (9.8a)
ve S () [16iv] as
bjv#0
Note that
a(e.b;v rbiv) g—s s
la (e, biv)| _ |( V) H-s (T)xH (F)| (9.8b)
ve HS(T) ||b[V||Hs([‘) veHS(I) ||biv||HS(F)
b;v#0 biv#0

Remark 9.2.3. Note that the quantities 1; are not computable because the supre-
mum (9.8) is taken over an infinite-dimensional space. Under the assumption that
the residuum is in L% (T'), computable lower and upper bounds which can be
approximated by quadrature formulae are given by

‘(r’ biz)H—S(F)xHS(F)‘

2
< ni < C Z h%S ”r”LZ(r)

157 sy o
tCo}
foralli € I, where
o ={teg:TNw; #0}. 9.9)

The constant C depends only on the shape-regularity of G.

9.3 Proof of Efficiency and Reliability

This section is devoted to the proof of efficiency and reliability of the error estima-
tors which have been presented in the previous sections. Again we will distinguish
between operators of negative order and operators of non-negative order. Throughout
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this section, we will assume that the surface I' is of class A%W (cf. Definition 8.3.1)
and we will restrict to the three-dimensional case.

9.3.1 Analysis of Operators of Negative Order

The analysis of the a posteriori error indicator as in Definition 9.2.1 will be based
on the localization of the globally defined norms of Sobolev spaces of positive frac-
tional order [cf. (2.85)]. Although this can be worked out for any Sobolev index
s € Roo\N we restrict the presentation to s € ]0, 1[ which includes the most
important case s = 1/2 for integral operators of negative order corresponding to
elliptic boundary value problems of second order. For the general case we refer to
[92].

We start with two preparatory lemmata.

Lemma 9.3.1. For A > 0 and for anyy € R? and & > 0, we have

1 2
—dX = —8_'1.
/Rz\m ly — x|[>** A

Proof. We introduce polar coordinates centered at y by x = y + r (cos ¢, sin )T
and obtain

1 *© 1 2
——dx = 27[/ ———rdr = —é’;‘_)L
-/Rz\Bg(y) ||y _ X||2+A e rZ-‘rA A'

O

Lemma 9.3.2. For A > 0 there exists a constant C), depending only on A and the
geometry of I such that

dsy < C,w:_)t

1
/m(l) ly — x>+

forallz € R3 and & > 0.

The proof is completely analogous to the estimate of the quantity S, (x) in the
proof of Theorem 3.3.5 and we leave the details as an exercise.

We start with the derivation of estimates of the H® (I")-norm by a sum of local
integrals for the case s € ]0, 1[. Recall the definition

2 2 2
IVIEs @) = IVIZ2(w) + VIEs @)

for any measurable w C I' and note that, for s € ]0, 1], we have
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2 vx) —v @I
|V|HS(CU) = / / y||2+2s dSdeX.

Lemma 9.3.3. Let s € 10, 1[. For any function v € H® (') and any boundary
element mesh G,

vx) —v -
|V|H‘(F) =< Z { // wd XdSy + 4C25dr 2s ||V||iz(r) (9103)
T Jor

‘EGg | - y
<Y s + 4Cas Y d7 7 VI - (9.10b)
ieZ T€G

where w, w; are as in (9.6) and d is as in (9.7). The constant C»5 depends only on
s and on the geometry of T'.

Proof. The additivity of the integral leads to the splitting

Vs = Z[/ v (x) YHVZ(L?J dsxdsyzZ{/TLT...+[TA\wT...}.

T€g T€G
.11
The second term can be estimated by

v —v @I
[/F\w xSy <2J;+2J7 (9.12)

where

I |V(Y)| I, / / |V(X)|
= —————5-dsxdsy, and J; Sydsy.
/r /F\wr Ix — [ **2 Mo, Jo X — YI|2+2S

Note that forany r € Gwehave {t e G: 71 C "} = {t € G :t C '} and,
thus, the summations of J! and J!! over all panels coincide as can be seen from

v ®)*
Yol = // . 2+2Sdsya’sx

€6 reg teg
v
[ o gz dsxdsy
«Ji |y —

tCIM\wr

reg teg X”
ClM\wy
|V(Y)| I
e //u P = 20
teG teg y— T€G
tCIM\wr

The combination of this equality with (9.11) and (9.12) implies that
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-
|V|%IS(F) = Z {[A —2+2stXdSy + 4].5

9.13)
o Ix—yl

Observe that I'\w; C I'\ By, (y) forany y € v and Lemma 9.3.2 implies

1 - 2
/ |V(Y)| (/F\w Ix y||2+2s ") dsy < Casd; 2 ||V||L2(r)'

Thus the first estimate (9.10a) is proved.

For the second estimate (9.10b), it remains to consider the first term in (9.13).
Note that for any pair of panels t,¢ € G with T N7 # @ there exists at least one
i € T suchthat T U1’ C w;. Hence we are led to the final estimate

O I R Ol i D 3 Dl I I

T,1€G i€7 1,7 Cw;
TNI#D

v —v@I?
= [[ 512y ———— 5 —dsxdsy.
ieT wj y”

The second term on the right-hand sides of (9.10) is a weighted sum of local
L?-norms of the function v and our goal is to estimate this terms by a sum of local
H°? (w;)-norms. Note that an estimate of the form

T€G

O

A7 W72y < C IV Fs @ (9.14)

for some small I"-neighborhood U/, of 7 cannot hold for arbitrary functions v €
H?* (T') as can be seen from the counter example v = 1.

e d=%t| hg—0
‘ L@ _ ’lu || | £ 00 if the ratio ||/ |Ue| is bounded away from zero.
T

2
||V||Hs(u,)

However, we will prove an estimate similar to (9.14) for functions being orthog-
onal to some boundary element functions. First, the result will be proved in some
two-dimensional parameter planes and then lifted to the surface. Let w; be as
in (9.6). We introduce a lifting y; : @; — w; from a two-dimensional convex
polygonal domain to w; as follows:

e If w; = t for some panel t € G the mapping y; is chosen as the reference
mapping y. of t (cf. Definition 4.1.2).

e For continuous boundary elements, w; is the union of a few panels, i.e., there
exist subsets G; C G — the cardinality |G;| of which is bounded by a constant
independent of the refinement level — such that
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o = U z.
T€G;

In this case, the lifting y; : @; — w; is as introduced in Sect. 4.3.5 (cf. Assump-
tion 4.3.25). Recall that ; is a two-dimensional convex and polygonal parameter
domain. Note that, for any T € G;, the pullback 7 := x; ! (1) is a plane panel
with straight edges.

The following Lemma is a refined version of the second Poincaré inequality (cf.
Theorem 2.5.9), where the dependence of the constants on the geometry is traced
more explicitly.

Lemma 9.3.4. Let D C R? be a polygonal domain. Then we obtain for s € 10, 1]
and any functions w € H® (D) the estimate

1 (diam D)>*2S 2

1
2 2
||W||L2(D) = ET |W|HS(D) + m '/D W(X) dx (915)

Proof. We proceed with

[D [D w () — w ()2 dxdy

- /D [D w (I dxdy + [D /D w ()| dxdy

- [ / (w0 W) +w@wE)) dxdy
D JD
=2|D||wlZ2py — 21/ (9.16)

where J := [, w. Hence (9.15) follows from

w(x) —w(y)?
21Dl IwlZ2py =21 1" = /D /D WIIX —y|***dxdy
<(diam D)2+2S

< (diam D)**** |w|35(p) -

O

In the following we will estimate the term |J |2 in (9.16) in more detail. Note
that, for general functions w € L? (D), the Cauchy—Schwarz inequality

|J|=][w
D

is sharp. In the next lemma, we will prove that, for functions w € L? which are
orthogonal to finite element basis functions, the estimate (9.17) can be strengthened.

< D" Wl 2(p) 9.17)
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Recall that, for the boundary element space S, the local nodal basis is denoted
by (b;);ez- First, we will prove the result for the pullbacks @; := x;! (w;) and then
lift it to the surface. For s > 0, we introduce the mesh-dependent Sobolev space

HJS_ (651) = {V e H* (651) : (V, b; o Xi)Lz(aF,') = 0}. (9.18)

Definition 9.3.5 (Local Residual Property). A boundary element space along with
a basis (b;), <7 satisfies the “local residual property” if there is some constant 0 <
y < 1 such that

/w
o;

Later, we will need the local residual property only for the two basic boundary
element spaces Sgo’_l, which consists of discontinuous piecewise constant func-

<ylal"? wlew,  Ywe HS (@) Viel (9.19)

. 1,0 .- . . . .
tions, and Sg which consists of continuous, piecewise affine boundary elements.

Lemma 9.3.6. For S = Sg’_l the local residual property is satisfied with y = 0
while, for S = S_é’o, the estimate (9.19) holds for y = 1/«/5

Proof. Let S = Sg’_l. Then it is sufficient to prove (9.19) for the unit panel 7,
i.e., either the unit triangle or the unit square [cf. (4.13)]. In this case, we have
H$ (1) = {we H*(%): [;w =0} and (9.19) holds with y = 0.

LetS = S_é’o. Fori € 7, let w; again denote the pullback to the two-dimensional
parameter domain and let b; := b; o y;. Forany w € HY} (®;), we have

/@w\zfai(l_z;)w

Pick some 7 C w; andlet T = )(i_l (1) C ;. Then bAr = IZ

SR

wllz2 @y - (9.20)

L2(a7)

_ is the affine function
T

A

2
which equals one at some vertex of T and zero at the others. Note that (1 — b,) isa

quadratic polynomial and the following quadrature rule is exact. Let m;, 1 <i < 3,
denote the midpoints of the edges of . Then

Z(l_g,)zzgi(l_ér)z(mi):%'

and for the integral over @; we get

I
-

~ 2
1= B2 < - 9.21)

The combination of (9.21) with (9.20) yields
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[

and y equals 1/~/2. O

1
< — |w,| 2wl 2@

Lemma 9.3.7. Let s € )0, 1] and assume that the boundary element space has the
local residual property. Then, for any i € T andw € H? (@;), we have

Iw]| . (diam &)™ W s s
L2(w) = 2(1—9y?) |CE| HS (w;) -

Proof. Let J; = f w. By (9.15) and the local residual property of S we obtain,
foranyw € HY (a)l) the estimate

1 (diam @;)>"%S
2 < —’
1 (dlama) )2 28
< 2# W@ +v? ||w||iz(a;i) :
l
From y € ]0, 1], the assertion follows. |

Now, we are in the position to prove a Poincaré-type inequality similar to (9.14).
The global version of H{ (@), for a boundary element space S, is given by

H} (S.T):={we H*(T)|VveS:(v.wrr =0}, (9.22)

ie, H{ (S,T) = S+ N H* (I'). The following remark states that piecewise smooth
surfaces can be covered by a selection of smooth patches w; provided that the mesh
width of the surface mesh is small enough. This property will be needed in the proof
of Lemma 9.3.9.

Remark 9.3.8. For a given surface I" of class A;W (cf- Definition 8.3.1) and any
regular surface mesh G with sufficiently small mesh width hg < hr the following
property holds. For all T € G there exists i € T such that T C w; and the mapping
i can be chosen such that y; € C? (@;).

We always choose y; € C? (@;) if possible. The subset Z5™°°" C 7 contains all
indices Z such that y; € C 2 (@7). Note that T’ = U w;.

i e smooth

Lemma 9.3.9. Let the surface T' be of class .Agw and hg < hr (c¢f. Remark 9.3.8).
Let Assumption 4.3.29 hold and let Assumption 4.3.17 or Assumption 4.3.18 hold.
Further, let s € 10, 1]. Then there exists a constant C| depending on the shape-
regularity constant and on T" such that

A7 o S CLY | Wi

T€g i€

forallv e HY (S,T).
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Proof. Let T € G and choose i € Tymoomn such that T C w;. Forv € HY (S,T) we
have
0= (V, bi)LZ(I‘) = /: B,-f/g,-dx,
@;
where E’; := bj o y;, v :=vo y;,and g; is the surface element. We conclude that

vgi € HY} (&;) and apply Lemma 9.3.7 to obtain

N e = Y d,—zs[|a|2g,- => d?”[lﬁgiIZgi_lv (9.23)
T T

T€G T€G T€G
TCw; TCw; TCw;

where 7 = y;! (v). By using ||g;! HLOO((:[,) = 0 |a;|/ |wi| (cf. (4.227), Lemma

4.3.27) we get

@ N @ _ N
> d7 lFa < pl@il > d> | gl < 1@k a2 [7gi|?.
T L2(7) | | T - lwi| | zeg © -
T€g t T€G T ! TCw; i
TCw;

TCw;
Note that d; > ¢4 (diamw;) where ¢4 depends only on the constant of shape-
regularity and on the global chart y (cf. Assumption 4.3.10). This leads to

0 ||
3 a7 2y, < 198132
L — . illp2(s;
= T () |a)l| (C4 dlama),-)zs ()
TCw;
Lemma 9.3.7 9 |£5;| (diam[ﬁ;)z—i_zs - >
< | V&i las @) -

- lwi| (¢4 diam w;)** 2 (1 — y2) |&;
There is a constant Cs depending only on the shape-regularity of the mesh and the
global chart y such that

(diam @;)* / |&;] < Cs.

This leads to

_ Cs0 |@y| diam@; \** . ,
A2 |v||2,,, < A2~ 9.24
2 4 Mz = 2(1—y2) |wi| \ cq diamw; Veilgs @y ©24

T€G
TCw;

Next, we will transform the H* (&;)-seminorm back to the surface. Corollary 4.3.30

implies that
- . diam @;
e
1

i &) = xi @

for all X, y € &;. Hence we obtain (with g§; = g; o )(l-_l)
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- g 0 — 7z GF .
VEilgs(y = dxd
il @y [w /w -y

ho 2t & ®—& W
< 2(?) / [v (X)|2 | 2+42s vl v| dsydsx
¢ diam &; o; o |[X =Yl gi (x)&i (y)

(b PEO-vOPE,
T\ Cdiamay I A
i w; Jw; ||X y” gl(x)

(9.25)
Recall (cf. (4.227) and Lemma 4.3.27) that
1 | | |oi |
: ~ = 0— d ooy = O—= 9.26
I | ey o] l1gill oo (@) | (9.26)

The difference g; (x) — & (y) can be estimated by

v x=x; %), y=x; %)
gi ()l =

|8 (x) — 81 (%) — & DI = IV&ill Lo X =TI

Corollary 4.3.30 diam a’;’;
<
- ch;

IV&illLoo @y Iy —xII
where c is as in Corollary 4.3.30. Recall that, for T C @;, the gradient of gz := g;|z

can be written as
Vgz = V|nz|| = g;lH;ﬁ;, 9.27)

where fiz := t! x t> with t* := 3 (y;],), k = 1,2, and
(Hz); ; = 0; (nz); 1<j<3, 1 <i<2.
Applying norms to both sides in (9.27) results in
1Vgzll ooy < (187" [ Loocs) 187 I Loocey 1Mz

where ||-||; is as in (8.70). The combination of (9.27) and Lemma 4.3.31 leads to

h; 3
1
Ve ooy < 69( ) ,

diam @;

where Cy depends only on 6, ®, Cr [cf. (8.49)], and the shape-regularity of the
surface mesh. Because i € Tymoom We have Vg; € C° (&;) and

hi \’
||Vgi||Loo(5;)§C9( ) :

diam @;

Thus we have proved that

Co( hi \?
5005l = 2 (s ) Iyl

diam @;
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Substituting this and (9.26) into (9.25) yields

. h; 242s ) 1
- - —c _ —————dsydsy
el =0 (Gang) (L PO [ e

(x) —v ()
/w /w v (x y“;yzl dsxdsy},

where Cjo depends only on ¢, 6, ®, Co, the shape-regularity of the surface mesh,
and the global chart y. Since ||x — -]~ is weakly singular, there exists a constant
C11 depending only on s € ]0, 1] such that

sup / Ix —y| 7> dsy < Ci1. (9.28)

XEW;

Note that the improved estimate < C; lh[2—2s is possible by introducing local polar
coordinates in the parameter plane, while it turns out that (9.28) is sufficiently sharp
for our purpose.

We have proved that

. 2+42s
~ 2 i 2 2
Feli = O (Gag ) (O ey + W)
and the combination with (9.24) leads to

_ 2 2 2
D A7 o < Crz V172w, + Ci3 Vs )

T€G
TCw;

< Ciohd Y A7 Wl 2 + Ci3 Vs ) -

€@
TCw;

where Ci2, C13 depends only on I', on y [cf. (9.19)], and on the shape-regularity of
1
the mesh. Thus, for sufficiently small mesh width g < (2C;2)™ 25, we have

_ 2 2
D A7 Ve < 2C13 Vs () -

T€G
TCw;

Finally, we obtain

— 2 — 2 2
DA e = Y. D A7 G S 2C13 ) Vs -

T€g jeZsmooth TE€G ieT
TCw;
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The combination of Lemmas 9.3.3 and 9.3.9 leads to the following localization
of the H® (I")-norm for fractional Sobolev indices s € |0, 1].

Theorem 9.3.10. Let T" be in the class A%W. Let the boundary element mesh be
shape-regular and satisfy the local residual property. Then

||V||HS(I‘) = (1 + 4C25CJ_) (Z |V|H‘Y(wi)) Vv e Hj_ (S, F) s
i€l

where Cyg is as in (9.10a) and C is as in Lemma 9.3.9.

Proof. Combine (9.10a) and Lemma 9.3.9. O

We come to the main result of this section stating that the local error indicators
as in Definition 9.2.1 are reliable and efficient for shape-regular meshes. Recall that
all boundary element spaces S which have been introduced in Chap. 4 contain either
the space of discontinuous, piecewise constant boundary elements or the space of
continuous, piecewise affine boundary elements, in short, the following condition is
satisfied

3Suin € {597, 55°} suchthat  Syip € S (9.29)

Furthermore, the overlap constant

Cop:=max{i €Z:17 Cw;} (9.30)
T€G

depends only on the kind of boundary element, i.e., the polynomial degree, the basis
functions, the type of panels (triangular/quadrilateral), and on the shape-regularity
but not on the mesh width.

Theorem 9.3.11. Let s € |—1,0[ and assume that A satisfies Assumption 9.1.1. Let
S be a boundary element space satisfying (9.29). Then the a posteriori estimate for
the error |[u — us || gs(ry of the Galerkin solution holds:

Cerr Y 17 < lu—usllzrsry < Crat y_ 07 (9.31)
ieZ ieZ

with n; as in Definition 9.2.1.

The efficiency estimate holds for any boundary element mesh G and the estimate
of reliability holds for shape-regular meshes.

The “efficiency” constant is given by Cey = C 12 /Col with Cy as in Assump-
tion 9.1.1 and the “reliability” constant C. depends only on T' and the shape-
regularity of the mesh.

Proof. Let e = us — u and recall the definition of the residual r = Ae. The lower
estimate follows from
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LT EDIDY [/ r - rz(f?s' dsydsx

ie€T ie€T rrceg =yl
wj
r r (X
[ [
T€G y”

C

2 1 2

= Collrllz-sa = C—Oz llell s ry -
1

For the proof of the upper estimate we assume that the mesh is shape-regular.
Note that the Galerkin orthogonality (4.120) implies that

(rvV)Yg—s@xms@ = (Ae. V) g—sayxgsqy = ale,v) =0  VveS. (9.32)

In particular, (9.32) holds for the space Spin C S. Since Spin has the local residual
property, we conclude that 7 € H ™ (Smin, I'). Hence we may apply Theorem 9.3.10
to obtain

Assumption 9.1.1
2 2 2 2 2
lells = CH -5y < C1aC3 Y IrlFr-sup -
€T

This is the upper estimate in (9.31) with Cre = C14C3. O

Remark 9.3.12. (a) The above theorem expresses the efficiency and reliability of
the local a posteriori error indicators. The upper estimate requires shape-
regular meshes. However, it is possible to modify the error indicators so that
the upper estimate becomes independent of the shape-regularity of the mesh
while then the efficiency estimate depends on that property. For the details, we
refer to [92, Theorem 5.2].

(b) In this section, we considered isomorphisms A : H* (I') — H~* (") for some
negative s. In [92, Theorem 5.2], the theory has been developed for more general
isomorphisms A : H*T25 (') — H® (") for some a > 0 and arbitrary s € R.

9.3.2 Analysis of Operators of Non-negative Order

We start by introducing the assumptions for the main theorem of this section.

Assumption 9.3.13. The sesquilinear form a : H® (I') x H* (I') — C satisfies a
Garding inequality of the form: There exist a constant Cg > 0 and an index o < s
such that, for allu € H® (T),

a (u,u) + Ca |l zory| = ¥ lull sy - (9.33)
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Furthermore, A : H® (I') — H™* (I") is an isomorphism for some s € [0, 1].
The next assumption is concerned with the boundary element space S

Assumption 9.3.14. Ifs > 1/2, the continuous, piecewise affine functions Sé’o are
contained in the boundary element space S and

S’ c s ccom). (9.34)

For Sé’o Z S, there holds 0 < s < 1/2and S = Sgp’_lfor some p € N.
In both cases, the basis (b;); 1 satisfies Y ;7 bi = 1.

Note that the standard case of an integral operator of positive order is the hyper-
singular operator which maps H'/2 (I') — H~'/2(T"). The conformity condition
S c HY2 () implies that the functions in S are continuous and the inclusion
(9.34) holds for all practical cases. The proof of the second part of the following
lemma is based on the Aubin—Nitsche duality technique (cf. Sect.4.2.5). In this
light, we assume some regularity for the adjoint problem:

Forv e H™*(T') findw, € H*(T') such that a(w,w,) = (v.w) 2y YweH*(T).
(9.35)

Assumption 9.3.15. There exist some t > 0 and some constant Cyg; > 0 such that,
for any v € H™STH(T), the solution of (9.35) satisfies w, € H*** (') and the
estimate

”WV”HSJFf(F) = Cadj ”V”Hfert(F)
holds.

Example 9.3.16. Let Q2 be a Lipschitz domain and consider the operator —Au + cu
for some ¢ > 0. Theorem 3.2.3 implies that the sesquilinear form for the cor-
responding hypersingular integral operator W : H'/2(I') — H'/2(I") satisfies
Assumption 9.3.15 forany 0 < ¢z < 1/2.

Lemma 9.3.17. Let G be a boundary element mesh and let S denote a boundary
element space which satisfies Assumption 9.3.14:

(a) There exists a constant C ;‘ab such that
Vwe H'(T) FpeS: Y b (v=0)zsw < C™ VI (9:36)
ieT

(b) Let us € S denote the solution of (9.2). For s = 1, we choose 0 <t < 1 such
that Assumption 9.3.15 holds and, for 0 < s < 1, we choose t such s +t <1
and Assumption 9.3.15 holds. Let Assumption 9.3.13 hold.

Then there exists a constant Cqya such that

||I/l —us ”HX_’(I‘) f Cdualhtg ||Lt —us ”HV(F) (937)
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Proof. Part a:
Case 1:s = 0.
The choice ¢ = 0 leads to

2 2 2 2
Db = N2y = D NbivlZa,) < max [5il ooy 2 V172

i€T i€ i€T
(9.38)

% 2
= GG ||V||L2(r)7

where
Cy:=maxcard{i €T :71 C w;}
T€G

depends only on the shape-regularity of the mesh and the polynomial degree of the
space S and Cj is as in Corollary 4.4.8.

Case2: s = 1:
Let Qg : L' (I') — Sé’o C S denote the Clément interpolation operator as in
Sect.4.3.5.Forve H' ('), letg := Qg (v) and e := v — ¢. Then

2 2 2 2
1Diel21 oy = €905 + biVelZagy < 21Vbi oo lel22(y)

2 2
+2|b; 200 (w;) ||Ve||L2(w,~)

Corollary 4.4.8 2 o >
< 20372 llellzz gy + 2CT Vel 2,

Theorem 4.3.28 o o
2.2 252 2
= Z(CCzcl +C101)||V||H1(wi~)7

=:C

where the constants are as in the quoted Corollary and Theorem and w/ is as in
(9.9). A summation over all i € 7 and using (9.38) gives

Sk = Oy = 20 (15 0= )20 + Ibieliriy)

i€T i€T
< GCrlMIZay + € DI o)
i€z '
= (GG + CT) M3y oy,

where C := max.eg card {i €el:tCow } again depends only on the shape-
regularity of the mesh.

Case 3:s €10, 1[ and Sé’o CS.
Forve H® (T'),letg := Qg (v) and e := v — ¢. We have
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(9.10a) —
||bie||%-15(1") = Z §4C2sdr 2 ”bie”i%r)
T€G

//‘Kb@@)(baw» sw}
e Jo, y||2+25 x=2y

<4Cys Y d7 ||biel| 7o

T€G
TCw;

_ 2
+42/[|ww%%ﬁ%%mw

T€G
TCw;

+2Z/ le (x)]? /'b () — b2+(2yS)| dsydse.  (9.39)

T€g

=:0(x)

Note that the term Q (x) vanishes if |w; N w;| = 0. Otherwise, we employ the
Lipschitz continuity of the basis functions to obtain

Corollary 4.4.8 1
bi () = bi D] = [billwrco) IX=¥I = Chy [x=y[ Vx.y€ o

Thus 1
|0 (x)| < Ch;? / ————dsy < Ch;*, (9.40)
« [x—y]

where the last inequality is proved in the same way as Theorem 3.3.5 by transform-
ing to a two-dimensional parameter plane, introducing local polar coordinates as in
(5.20a)—( 5.20c) and then integrating with respect to the radial coordinate.

This leads to

2125 4SxdSy

_ 2
Z hr—ZS ”e”iz(r) +/ / |e (X) e(y)|

nmﬂzmqu(

teo oi I =y
TCw;
-2 2

o) K ||e||L2(wf)>

T€G

|o; Nw[>0
-2 2 -2 2
SC(XNH”MH@+MW@H+EZMSWM%J’
€G T€g
TCw; tCof™*
where 0 = U reg Tand w/* = U reg T. A summation overalli € T

TNw; £0 TNw} #0

yields
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N (4.237b)
IbielFsry = €' (|e|%p(r) +) o h ||€||iz(f)) < C" iy -

€@

Case4:s €10,1[and S5° ¢ S.
From Assumption 9.3.14 it follows that 0 < s < 1/2 and § = Sé”_l. We choose

o = Ié”_l (v), where Ié”_l is as in Theorem 4.3.19 and obtain, analogously as
(9.39),

||bi€||%qs(p) < 4Cys Z dr—2s ||b,'€||iz(r)

T€G
TCw;

_ 2
= [ b P %dww

T€G
TCw;

+2Z/ le (x)|* O (x) dsy.

T€G

Since the basis functions are discontinuous we obtain (cf. (9.40)

|0 (x)| < [ I Hzﬂsa’sy < Ch™?,

The rest of the proof is a repetition of the arguments as for the previous case.

Part b:
Statement b is proved by the Aubin—Nitsche duality technique (cf. Sect. 4.2.5). We
apply (4.177) to obtain

Iy = wlls e
e —uslgrs—rry < Clu—uslmsqy  sup i 10
veH—s+ @00y €S IVl g—s+1(r)

with w, as in (9.35). Fors = 1, we have s + ¢ > 1, where 0 < ¢ < 1 is chosen
such that Assumption 9.3.15 is satisfied. Hence H**! (I') C C°(T") and the nodal
interpolant gl’o : HST (') — S is well defined. We employ Theorem 4.3.22 to
obtain

< CI" |wyll s+ ()

inf ||lw, —w|| gs <Hw—11’0w
wesS ” Y ”HA(F) - Y g Y Hs ()

< CCadjht ||V||Hfs+t(1'*),

where C is as in Theorem 4.3.22.
For 0 < s < 1, we choose ¢t > 0 such that Assumption 9.3.15and s + ¢ < 1
hold. Let Qg : H*t' (I') — S denote the Clément interpolation operator as in
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Definition 4.3.24. Then (4.237b) and Assumption 9.3.15 imply that

;21; Iwe =Wl sy < we = Qowillgsry < Ch' [woll s+ r)

< CCadjht ||V||H7s+t(1'*).

O

For the proof of the next Theorem 9.3.18 we have to introduce further notation.
We consider decompositions D = {Z,,,}4”_, of 7 into non-empty, pairwise disjoint

dp
subsets Z, CZ,1 <m < gp,suchthatZ = |J Z,, and

m=1

Vi<m=<gqgp Vi,je€ly:wiNw;=40.

A decomposition D which satisfies these conditions and consists of a minimal num-
ber of subsets {Z,, Z]’:l is called minimal disjoint decomposition of Z. For such a
decomposition, we define a second overlap constant [cf. (9.30)] by

* Lp—
ol *— 4D-

Now we have all ingredients to prove the main theorem of this section which
states that the error indicators as in Definition 9.2.2 for operators of positive order
are reliable and efficient.

Theorem 9.3.18. Let Assumptions 9.1.1, 9.3.13, 9.3.14 and 9.3.15 be satisfied for
some s € [0,1]. Let e = u — ug be the error for the Galerkin solution. Then the
estimate

Cenr 17 < llellzrsry < Ceat D07 (9:41)
ieT ieT
holds, where the error indicators n; are as in Definition 9.2.2 and

Ceff = (Coqclz)_l

(RN

with Cy is as Assumption 9.1.1. The constant Cy is given by

Csy=2 ifCs = 0in (9.33),

Cr =
rel 4C5EPy =2 if C > 0,

(9.42)

where y is as in (9.33) and C;mb as in (9.36). In the case Cg > 0, we have to

assume, in addition, that the mesh size is sufficiently small, i.e., hg < ho, for some
ho > 0 (cf. Theorem 4.2.7).
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Proof. Part a: Proof of efficiency.
LetD = {Z, }z‘il denote a minimal disjoint decomposition of the index set Z and
set

Dy, = U supp b; .

1€y,

In the first step, we will prove the estimate

2
SUIE) [, biv) s myxms o |
: veHS (T
t€1m 1ivll s (ry=1
2
: r,b-w —s s
< ap e (bl DD = My, (9.43)
weHS () Y iez, 1Biwllersry
| Dy Nsupp w|>0
Lete > 0. Fori € Z,,, there exist f; € H® (I") with
1bi fill gsqry = 1 (9.44)
and
[(r, bi £i) = ey ’2 > sup  |(r, bl‘V)H—x(F)XHx(F)‘Z —¢& with g := —
: @xHm] 2 P card I,,
116i vll s (ry =1
(9.45)

Because the intersections supp b; Nsupp b; have zero measure for all i, j € Z,, with
i # j,thereexists w € H® (") such that for all i € Z,, we have

Wlsupp; = Ci Jilsuppp;  With  ¢i := (r.bi fi) p2(r)- (9.46)
This function satisfies
biw =c¢;bi fi onT foralli € 7. 9.47)

The definition of M,, [cf. (9.43)] implies that

2 — 2
- | Yiez,, (1 biw) g-syxmsy|” 041 | Xiez,, G (1 bi fi) s yers (|

My > 2 2 2
ZieIm ||biW||HS(r) Ziel’m lei ™ 11bi fi ”HS(F)

2 2
(9.44), (9.46) ‘Ziezm |ci | ‘

2
> = Z |(r,bifi)H—S(F)><HS(F)|
ZieIm |ei | i€Tm
(9.45) 2
> sup |(r,biV)H*S(F)xHS(F)| —é
i€, ve H*(T")
16ivll s (ry=1

Since & > 0 was arbitrary we have proved (9.43).
From (9.43) we derive
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2
3 ©.3) " (. 0iv) s (yxrs () |
i = 2
: ; €H* (') 1Vl (-
i€l lEImvb,-v7é0 J @ )

=Y s b g
ve HS(T")

F€lm 16ivll g (ry=1
9.43)
-
This leads to
2
S < u e, ez, b0 )|
ni < My = sup 3

i€Tm we HS () Y iz, 1Biwllersry

| Dy Nsupp w|>0

2
2 2 ” ZiEIm biw” Hs5(T)
< N Alg—s@ymsa) llellzs @) sup

2
weHS(T) D ier,, 1iwlasm
| Dy Nsupp w|>0

Lemma 4.1.49b 5 2 2
< > ANz —s oy s @y el sy

and we obtain the estimate for the error indicators by

Co]
5Ci 2 2
Y=Y Y m< 20 ANz =s 0y ms @y el s -
ieZ m=1i€Z;,

Thus we have proved the left side in (9.41).

Part b: Proof of reliability.
The Galerkin orthogonality and the Definition 9.2.2 imply for any v € S that

la(e.e)| = la(e.e—v)| = | ale.bi(e —w))‘
i1€T
<Y nillbi 6= lgsay = [D 07 > lIbi (e = @) Frsry- (9:48)
i€T i€T I1€T

From (9.36) we conclude that there exists ¢ € S such that

2 S 2
> ki (e = Dllzs @y < € llell s ry-
I1€T

Inserting this into (9.48) and using Garding’s inequality (9.33) yields
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2 2 2
Y llelasay < |a(e,e) + Ca ”e”HU(F)‘ <V C5 lell s ry E n7+Ca llel o r
\iez

(9.49)
for some 0 < 5. If Cg = 0 then the right estimate in (9.41) is proved with Cy as in
(9.42).

If Cg > 0 we employ (9.37) to obtain

”e”HS*f(l") = Cdualhtg ||e||H3(I‘)

We may choose ¢ > 0 always sufficiently small such that ¢ < s — ¢ and hence

lell goy < lell gs—:ry < Cdualhtg lell as ry-

Substituting this estimate into (9.49) yields

7 lelzsy = |a (.0 + Co o o)

2
< VECE el gsqry [ 0% + CaClah¥ llelFsry.
i1€T

If the minimal mesh width /¢ is chosen such that
2 g2t _ 1
CoCualty = 5V

we obtain
—2 stab 2
lell sy < 4y72C3° Y
ieT
and this is the assertion. |

In some cases, the boundary integral operator has a non-trivial, finite-dimensional
null space as, e.g., the hypersingular operator for the Laplace operator on closed
manifolds, where the null space is spanned by the constant functions. Then the
operator A : H* (I') - H™° (") is not an isomorphism. On the other hand, the
restriction A : H — H’ to some quotient space H := H* (') /N, where N/
is finite-dimensional, is an isomorphism with respect to the induced norms. Such
operators are considered in the following remark.

Remark 9.3.19. Assume that A : HS (I') — H ™ (') does not satisfy Assump-
tion 9.1.1. Assume that, for a quotient space H := H?* (L) /N with some finite-
dimensional subspace N C H* (T'), Assumption 9.1.1 holds for the restricted
operator A : H — H'. Let S be a boundary element space for H® (T') and
let the index set T correspond to the nodal points for S. Assume further that
N C S c H* (') which, e.g., is satisfied for the hypersingular operator for the
Laplacian on closed manifolds. Then S := S /N is a finite-dimensional subspace
of 'H. For other operators such as, e.g., the Helmholtz operator, the null space of



9.3 Proof of Efficiency and Reliability 543

the corresponding hypersingular operator, in general, does not belong to S. Then
the following comments directly apply for this case only if the null space N, resp.,
a basis thereof, is known.

Assume that (9.33) holds for all u € 'H. Let the error indicators be defined as
before by (9.8a). For F € H', let us denote the Galerkin solution of

a(us,v) = F (v) YvesS

and let e := u — ugs denote the corresponding error. Then Theorem 9.3.18 and its
proof remain valid without any changes. Note that the space S in Part b of the proof
must not be replaced by S.

9.3.3 Bibliographical Remarks, Further Results
and Open Problems

As we saw in Chaps.3 and 4, boundary integral operators obtained via boundary
reduction of elliptic boundary value problems via the direct method are boundedly
invertible between fractional order Sobolev spaces on the boundary. The deriva-
tion of residual a posteriori error estimates in fractional Sobolev norms which are
obtained as sums of O(/N) many scaled local residual error bounds is an easy con-
sequence of the bounded invertibility of the boundary integral operators in Sobolev
spaces which we established in Chaps. 3 and 4. The key to obtaining efficiently com-
putable upper bounds for the residual in the relevant, fractional Sobolev norms is the
localization of these norms, i.e., their representation as sums of O(N ) many scaled
local residual error bounds. We showed, based on the work of B. Faermann [89, 90,
92] on the localization of fractional order Sobolev norms, how to obtain computable
upper bounds for the intrinsically nonlocal fractional order Sobolev norms of the
weak residual. While this is not possible for general functions, it is feasible for the
weak residual by exploiting its Galerkin orthogonality as we explained in Sects. 9.2
and 9.3. This implies in particular that an analogous residual estimate for collocation
BEM will require additional technical steps to achieve O(N) complexity.

Due to the appearance of fractional order Sobolev norms, the derivation of upper
bounds for the error of Galerkin discretizations of integral equations is substantially
more involved than in the case of second order, elliptic partial differential equations,
where it involves only elementwise integration by parts and, once more, Galerkin
orthogonality.

Computable residual a posteriori error estimators are a convenient tool to decide
when to terminate mesh refinement procedures in practical computations. If these
estimators are obtained from sums of (squared) error contributions which are local-
ized to (a patch of) elements, it is suggestive to use these contributions as error
indicators, i.e., as a measure for the relative contributions to the global error bound
from the element associated with the error indicator. This is usually successful in
computational practice. Note, however, that this reasoning is completely heuristic:
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there is a priori no reason at all why a localized quantity should be in one-to-
one correspondence with the source of discretization error in the Finite Element
Galerkin projection. In fact, counterexamples to this heuristic reasoning exist, even
in the case of local operators, i.e., for finite element discretizations of elliptic par-
tial differential equations. Nevertheless, in recent years, substantial progress in the
analysis of adaptive Finite Element Methods for elliptic partial differential equations
has been made. Proofs of optimality of adaptive finite element methods for partial
differential equations are by now available.

While the mathematical understanding of adaptive Finite Element Methods
(AFEM) has proceeded substantially in the past years and has, at least for second
order elliptic PDEs and conforming FEM, reached a certain maturity, the corre-
sponding situation for mathematical analysis of adaptive Galerkin BEM considered
in this book is, at the time of writing, still considerably less developed. While relia-
bility and efficiency of computable residual a posteriori error estimators is available
in Sects. 9.2 and 9.3, neither a convergence result along the lines of [82] nor any
kind of optimality result is known to us at time of writing for Galerkin BEM based
on the standard shape functions described in Chap. 4.

There is, however, an alternative approach of wavelet based Galerkin BEM which
does have a complete mathematical theory with optimality and convergence rates
at linear computational complexity available. It is based on piecewise polynomial,
spline wavelets as basis functions for the subspaces used in the Galerkin discretiza-
tion. The construction of such spline wavelet basis functions on general polyhedrain
R3 is involved, and their supports are considerably larger than the supports of basis
functions described in Chap. 4 above. The effort in their construction and implemen-
tation is, however, worthwhile, since their use in Galerkin BEM achieves two pur-
poses: (1) matrix compression and (2) optimal preconditioning in a unified fashion.

Multilevel Preconditioning in linear complexity is, for these basis functions,
achieved by a simple diagonal scaling of the stiffness matrix due to the fact that
the wavelets constitute Riesz bases of the energy spaces for the boundary integral
operators.

Matrix compression implies that the Galerkin stiffness matrix in these wavelet
bases is, while still being densely populated, numerically sparse. This means that
all but O(N) nonzero matrix entries out of the N2 overall matrix entries need to
be actually computed, and that a mathematical analysis reveals the location and
the accuracy of these O(N) essential matrix entries. We refer to [208] and to the
recent paper [76] and the references therein for details and further results. Note that,
in this setting, acceleration techniques of clustering or fast multipole type are not
required any more. We remark, however, that fast multipole accelerations are natu-
rally robust with respect to the complexity of the boundary surface, since they are
based on the (coordinate free) approximation of the fundamental solution in ambient
space, while the analysis of wavelet matrix compression methods reveals a substan-
tial dependence of the matrix compression error on the surface parametrizations and
their derivatives.

We note, in closing, that also in the wavelet Galerkin approach to the discretiza-
tion of BIEs, the numerical quadrature of the diagonal entries of the Galerkin
stiffness matrix requires the quadrature techniques presented in Chap. 5 above.



References

10.

11.

12.

13.
14.

15.

16.

17.

18.

19.

20.

S.A

. M. Abramowitz and L. A. Stegun. Handbook of Mathematical Functions. Applied Mathematics
Series 55. National Bureau of Standards, U.S. Department of Commerce, 1972.

. M. Ainsworth and J. T. Oden. A Posteriori Error Estimation in Finite Element Analysis. Wiley,
New York, 2000.

. H. W. Alt. Lineare Funktionalanalysis. Springer, Berlin, 1985.

. F. P. Andriulli, K. Cools, H. Bagci, F Olyslager, A. Buffa, S. H. Christiansen, and
E. Michielssen. A multiplicative Calderon preconditioner for the electric field integral
equation. /EEE Trans. Antennas Propagation, 56(8, part 1):2398-2412, 2008.

. S. Arden, S. N. Chandler-Wilde, and S. Langdon. A collocation method for high-frequency
scattering by convex polygons. J. Comput. Appl. Math., 204(2):334-343, 2007.

. D. N. Arnold and W. L. Wendland. On the asymptotic convergence of collocation methods.
Math. Comp., 41:197-242, 1983.

. K. E. Atkinson. A Survey of Numerical Methods for the Solution of Fredholm Integral
Equations of the Second Kind. SIAM, Philadelphia, 1976.

. K. E. Atkinson. The Numerical Solution of Integral Equations of the Second Kind. Cambridge
Univiversity Press, Cambridge, 1997.

. 1. Babuska and A. K. Aziz. The Mathematical Foundation of the Finite Element Method.

In A. K. Aziz, editor, The Mathematical Foundation of the Finite Element Method with

Applications to Partial Differential Equations, pages 5-359. Academic, New York, 1972.

I. Babuska and W. C. Rheinboldt. A-posteriori error estimates for the finite element method.

Int. J. Numer. Meth. Eng., 12:1597-1615, 1978.

I. Babuska and W. C. Rheinboldt. Error estimates for adaptive finite element computations.

SIAM J. Numer. Anal., 15:736-754, 1978.

I. Babuska and T. Strouboulis. The Finite Element Method and Its Reliability. Clarendon,

Oxford, 2001.

P. K. Banerjee. The Boundary Element Methods in Engineering. McGraw-Hill, London, 1994.

W. Bangerth and R. Rannacher. Adaptive Finite Element Methods for Differential Equations.

Birkhiuser, Basel, 2003.

L. Banjai and S. A. Sauter. A refined Galerkin error and stability analysis for highly indefinite

variational problems. SIAM J. Numer. Anal., 45(1):37-53, 2007.

R. Bank. The efficient implementation of local mesh refinement algorithms. In I. Babuska,

J. Chandra, and J. E. Flaherty, editors, Adaptive computational methods for partial differential

equations, Proc. Workshop, College Park, MD, 1983, pages 74-81. SIAM, Philadelphia, 1983.

R. E. Bank. PLTMG User’s Guide Version 6.0. SIAM, Philadelphia, 1990.

R. E. Bank. PLTMG User’s Guide Version 9.0. Technical report, University of San Diego,

2004.

M. Bebendorf. Hierarchical Matrices, volume 63 of Lecture Notes in Computational Science

and Engineering. Springer, Berlin, 2008.

M. Bebendorf and S. Rjasanow. Adaptive low-rank approximation of collocation matrices.

Computing, 70(1):1-24, 2003.

. Sauter and C. Schwab, Boundary Element Methods, Springer Series 545

in Computational Mathematics 39, DOI 10.1007/978-3-540-68093-2,
© Springer-Verlag Berlin Heidelberg 2011



546

21

22
23

24.

25.

26.

27

28.

29.

30.

31.

32.

34.

35.

36

37.

38.

39.

40.

41.

42.

44,

45.

46.

References

. A. Bendali. Numerical analysis of the exterior boundary value problem for the time-harmonic
Maxwell equations by a boundary finite element method. Part 2: The discrete problem. Math.
Comp., 43:47-68, 1984.

. J. Bergh and J. Lofstrom. Interpolation Spaces. Springer, Berlin, 1976.

. M. Bonnet. Boundary Integral Equation Methods for Solids and Fluids. Wiley, Chichester,

1999.

S. Bérm. Data-sparse approximation of non-local operator by H2-matrices. Linear Algebra

Appl., 422(2-3):380-403, 2007.

S. Borm and L. Grasedyck. Hybrid cross approximation of integral operators. Numer. Math.,

101(2):221-249, 2005.

S. Borm and S. A. Sauter. BEM with linear complexity for the classical boundary integral

operators. Math. Comp., 74(251):1139-1177, 2005.

. D. Braess. Finite Elements, 3rd edition. Cambridge University Press, Cambridge, 2007.

H. Brakhage and P. Werner. Uber das Dirichletsche AuBenraumproblem fiir die Helmholtz-

sche Schwingungsgleichung. Arch. der Math., 16:325-329, 1965.

J. H. Bramble. Multigrid Methods. Pitman Research Notes in Mathematics. Longman

Scientific & Technical, Essex, 1993.

J. H. Bramble, Z. Leyk, and J. E. Pasciak. The analysis of multigrid algorithms for pseudo-

differential operators of order minus one. Math. Comp., 63:461-478, 1994.

J. H. Bramble, J. E. Pasciak, and P. S. Vassilevksi. Computational scales of Sobolev norms

with applications to preconditioning. Math. Comp., 69:462-480, 1999.

C. A. Brebbia, J. C. F. Telles, and L. C. Wrobel. Boundary Element Techniques: Theory and

Applications in Engineering. Springer, Berlin, 1984.

. S. B. Brenner and L. R. Scott. The Mathematical Theory of Finite Element Methods. Springer,

New York, 1994.

O. P. Bruno. Fast, high-order, high-frequency integral methods for computational acoustics

and electromagnetics. In Topics in Computational Wave Propagation, volume 31 of Lecture

Notes in Computational Science and Engineering, pages 43—82. Springer, Berlin, 2003.

O. P. Bruno. New high-order integral methods in computational electromagnetism. CMES

Comput. Model. Eng. Sci., 5(4):319-330, 2004.

. O. P. Bruno and C. A. Geuzaine. An O(1) integration scheme for three-dimensional surface

scattering problems. J. Comput. Appl. Math., 204(2):463-476, 2007.

A. Buffa and S. H. Christiansen. The electric field integral equation on Lipschitz screens:

definitions and numerical approximation. Numer. Math., 94(2):229-267, 2003.

A. Buffa and S. H. Christiansen. A dual finite element complex on the barycentric refinement.

Math. Comp., 76(260):1743-1769, 2007.

A. Buffa and P. Ciarlet, Jr. On traces for functional spaces related to Maxwell’s equations.

Part I: An integration by parts formula in Lipschitz polyhedra. Math. Meth. Appl. Sci., 21:

9-30, 2001.

A. Buffa, M. Costabel, and C. Schwab. Boundary element methods for Maxwell’s equations

on non-smooth domains. Numer. Math., 92(4):679-710, 2002.

A. Buffa and R. Hiptmair. Galerkin boundary element methods for electromagnetic scattering.

In M. Ainsworth, P. Davis, D. Duncan, P. Martin, and B. Rynne, editors, Topics in Com-

putational Wave Propagation. Direct and inverse Problems, volume 31 of Lecture Notes in

Computational Science and Engineering, pages 83—124. Springer, Berlin, 2003.

A. Buffa and R. Hiptmair. A coercive combined field integral equation for electromagnetic

scattering. SIAM J. Numer. Anal., 42(2):621-640, 2004.

. A. Buffa and R. Hiptmair. Regularized combined field integral equations. Numer. Math.,

100(1):1-19, 2005.

A. Buffa, R. Hiptmair, T. von Petersdorff, and C. Schwab. Boundary element methods for

Maxwell transmission problems in Lipschitz domains. Numer. Math., 95(3):459-485, 2003.

A. Buffa and S. A. Sauter. On the acoustic single layer potential: Stabilization and Fourier

analysis. SIAM J. Sci. Comput., 28(5):1974-1999, 2006.

A. P. Calderon and A. Zygmund. Singular integral operators and differential equations. Am.

J. Math., 79:901-921, 1957.



References 547

47.

48.

49.

50.

S1.

52.

53.

54.

55.

56.

57.

58.

59.

60.
61.

62.

63.

64.

65.

66.

67.

68.

69.

70.

C. Carstensen. Efficiency of a-posteriori BEM-error estimates for first kind integral equations
on uniform meshes. Math. Comp., 65:69-84, 1996.

C. Carstensen. An a-posteriori error estimate for a first-kind integral equation. Math. Comp.,
66:139-155, 1997.

C. Carstensen and S. A. Funken. Coupling of mixed finite elements and boundary elements.
IMA J. Numer. Anal., 20(3):461-480, 2000.

C. Carstensen, S. A. Funken, and E. P. Stephan. An a-posteriori error estimates for
hp-boundary element methods. Appl. Anal., 61:233-253, 1996.

C. Carstensen, M. Maischak, D. Praetorius, and E. P. Stephan. Residual-based a posteriori
error estimate for hypersingular equation on surfaces. Numer. Math., 97:397-425, 2004.

C. Carstensen, M. Maischak, and E. P. Stephan. A posteriori error estimate and k-adaptive
algorithm on surfaces for Symm’s integral equation. Numer. Math., 90(2):197-213, 2001.

C. Carstensen and E. P. Stephan. A-posteriori error estimates for boundary element methods.
Math. Comp., 64:483-500, 1995.

C. Carstensen. and E. P. Stephan. Coupling of FEM and BEM for a nonlinear interface
problem: The &-p version. Numer. Meth. Partial Diff. Eqns., 11(5):539-554, 1995.

S. Chandler-Wilde and I. Graham. Boundary integral methods in high frequency scattering. In
B. Engquist, A. Fokas, E. Hairer, and A. Iserles, editors, Highly Oscillatory Problems, pages
154-193. Cambridge University Press, Cambridge, 2009.

S. Chandler-Wilde and P. Monk. Wave-number-eplicit bounds in time-harmonic scattering.
SIAM J. Math. Anal., 39:1428-1455, 2008.

S. N. Chandler-Wilde and S. Langdon. A Galerkin boundary element method for high fre-
quency scattering by convex polygons. SIAM J. Numer. Anal., 45(2):610-640 (electronic),
2007.

S. N. Chandler-Wilde and M. Lindner. Wave problems in unbounded domains: Fredholm-
ness and the finite section method. In Fluids and waves, volume 440 of Contemporary
Mathematics, pages 115-122. AMS, Providence, RI, 2007.

S. N. Chandler-Wilde and M. Lindner. Boundary integral equations on unbounded rough sur-
faces: Fredholmness and the finite section method. J. Integral Equations Appl., 20(1):13-48,
2008.

G. Chen and J. Zhou. Boundary Element Methods. Academic, New York, 1992.

A. Chernov, M. Maischak, and E. P. Stephan. A priori error estimates for ip penalty BEM
for contact problems in elasticity. Comput. Meth. Appl. Mech. Eng., 196(37-40):3871-3880,
2007.

M. M. Chipot. Elliptic Equations: An Introductory Course. Birkhduser, Basel, 2009.

S. H. Christiansen. Résolution des équations intégrales pour la diffraction d’ondes acous-
tiques et électromagnetiques. PhD thesis, I’Ecole Polytechnique, Paris, 2002.

S. H. Christiansen. Discrete Fredholm properties and convergence estimates for the electric
field integral equation. Math. Comp., 73(245):143-167, 2004.

S. H. Christiansen and J. C. Nédélec. Des préconditionneurs pour la résolution numérique
des équations intégrales de frontiere de 1’acoustique. C. R. Acad. Sci. Paris Sér. 1 Math.,
330(7):617-622, 2000.

S. H. Christiansen and J. C. Nédélec. Des préconditionneurs pour la résolution numérique des
équations intégrales de frontiere de I’électromagnétisme. C. R. Acad. Sci. Paris Sér. [ Math.,
331(9):733-738, 2000.

S. H. Christiansen and J. C. Nédélec. A preconditioner for the electric field integral equation
based on Calderon formulas. SIAM J. Numer. Anal., 40(3):1100-1135, 2002.

P. G. Ciarlet. The Finite Element Method for Elliptic Problems. North-Holland, Amsterdam,
1987.

P. Clément. Approximation by finite element functions using local regularization. RAIRO,
Sér. Rouge Anal. Numér., R-2:77-84, 1975.

D. L. Colton and R. Kress. Integral Equation Methods in Scattering Theory. Wiley, New York,
1983.



548

71

72

73.

74.

75.

76.

71.

78.

79.

80.

81.

82

83.

84.

85.

86

87.

88.

89.

90.

91.

92.

93.

94.

References

. M. Costabel. Symmetric methods for the coupling of finite elements and boundary elements.
In C. A. Brebbia et al., editor, Boundary Elements IX, volume 1, pages 411-420. Springer,
Berlin, 1987.

. M. Costabel. Boundary integral operators on Lipschitz domains: Elementary results. SIAM

J. Math. Anal., 19:613-626, 1988.

M. Costabel. A symmetric method for the coupling of finite elements and boundary ele-

ments. In J. R. Whiteman, editor, Proc. 6th Conf. on the Mathematics of Finite Elements and

Applications VI, Uxbridge 1987 (MAFELAP 1987), pages 281-288. Academic, New York,

1988.

M. Costabel and W. L. Wendland. Strong ellipticity of boundary integral operators. J. Reine

Angew. Math., 372:34-63, 1986.

W. Dahmen, B. Faermann, 1. G. Graham, W. Hackbusch, and S. A. Sauter. Inverse inequalities

on non-quasi-uniform meshes and application to the mortar element method. Math. Comp.,

73(247):1107-1138, 2004.

W. Dahmen, H. Harbrecht, and R. Schneider. Adaptive methods for boundary integral equa-

tions: Complexity and convergence estimates. Math. Comp., 76(259):1243-1274, 2007.

E. Darve. The fast multipole method (I) : Error analysis and asymptotic complexity. SIAM J.

Numer. Anal., 38(1):98-128, 2000.

E. Darve. The fast multipole method: Numerical implementation. J. Comput. Phys., 160(1):
195-240, 2000.

M. Dauge. Elliptic Boundary Value Problems on Corner Domains. Lecture Notes in Mathe-

matics. Springer, New York, 1988.

R. Dautray and J. L. Lions. Mathematical Analysis and Numerical Methods for Science and

Technology, volume 4. Springer, Berlin, 1990.

P. J. Davis. Interpolation and Approximation. Blaisdell, New York, 1963.

. W. Dorfler. A convergent adaptive algorithm for Poisson’s equation. Numer Math.,

73:419-448, 1996.

M. G. Duffy. Quadrature over a pyramid or cube of integrands with a singularity at a vertex.

SIAM J. Numer. Anal., 19:1260-1262, 1982.

G. Dziuk. Finite elements for the Beltrami operator on arbitrary surfaces. In S. Hildebrandt

and R. Leis, editors, Partial Differential Equations and Calculus of Variations, volume 1357

of Lecture Notes in Mathematics, pages 142—155. Springer, New York, 1988.

Y. V. Egorov and M. A. Shubin. Partial Differential Equations I, Encyclopaedia of Mathe-

matical Sciences edition. Springer, Heidelberg, 1992.

. J. Elschner. The double layer potential operator over polyhedral domains I: Solvability in

weighted Sobolev spaces. Appl. Anal., 45:117-134, 1992.

J. Elschner. The double layer potential operator over polyhedral domains II: Spline galerkin

methods. Math. Meth. Appl. Sci., 15:23-37, 1992.

S. Erichsen and S. A. Sauter. Efficient automatic quadrature in 3-D Galerkin BEM. Comput.

Meth. Appl. Mech. Eng., 157:215-224, 1998.

B. Faermann. Local a-posteriori error indicators for the Galerkin discretization of boundary

integral equations. Numer. Math., 79:43-76, 1998.

B. Faermann. Localization of the Aronszajn—Slobodeckij norm and application to adaptive

boundary element methods. Part I. The two-dimensional case. IMA J. Numer. Anal., 20:

203-234, 2000.

B. Faermann. Lokalisierungstechniken fiir Sobolev—Normen und Anwendungen auf adaptive

Randelementmethoden (in German). Habilitationsschrift, Universitét Kiel, 2000.

B. Faermann. Localization of the Aronszajn—Slobodeckij norm and application to adaptive

boundary element methods. Part II. The three-dimensional case. Numer. Math., 92(3):467—

499, 2002.

M. Feistauer, G. C. Hsiao, and R. E. Kleinman. Asymptotic and a posteriori error estimates

for boundary element solutions of hypersingular integral equations. SIAM J. Numer. Anal.,

33:666-685, 1996.

R. Fletcher and C. H. Reeves. Function minimization by conjugate gradients. Comput. J.,

7:149-154, 1964.



References 549

95
96
97
98

99.
100.

101.

102.

103.

104.

105.

106.

107.

108.

109.

110.

111.

112.

113.

114.

115

116.

117.
118.

119.

120.

121.

122.

123.

. O. Forster. Analysis 2. Vieweg, Brunswick, 1993. 5. Auflage.

. 1. Fredholm. Sur une classe d’equations fonctionelles. Acta Matematica, 27:365-390, 1903.

. A. Friedman. Partial Differential Equations. Holt, Rinehart and Winston, New York, 1969.

. A. Friedman. Foundations of Modern Analysis. Dover, New York, 1982. Reprint of the 1970
original.

W. Gautschi. Numerical Analysis. Birkhduser, Basel, 1997.

D. Gilbarg and N. S. Trudinger. Elliptic Partial Differential Equations of Second Order.
Springer, Berlin, 1983.

G. Giraud. Sur une classe generale d’equation a integrales principales. C. R. Acad. Sci. Paris,
202:2124-2126, 1936.

M. Gnewuch and S. A. Sauter. Boundary integral equations for second order elliptic boundary
value problems. Technical Report 55, Max-Planck-Institut, Leipzig, Germany, 1999.

S. A. Goreinov, E. E. Tyrtyshnikov, and N. L. Zamarashkin. A theory of pseudoskeleton
approximations. Linear Algebra Appl., 261:1-21, 1997.

I. G. Graham, L. Grasedyck, W. Hackbusch, and S. A. Sauter. Optimal panel-clustering in the
presence of anisotropic mesh refinement. SIAM J. Numer. Anal., 46(1):517-543, 2008.

I. G. Graham, W. Hackbusch, and S. A. Sauter. Discrete boundary element methods on general
meshes in 3D. Numer. Math., 86:103—-137, 2000.

I. G. Graham, W. Hackbusch, and S. A. Sauter. Hybrid Galerkin boundary elements: Theory
and implementation. Numer. Math., 86:139—-172, 2000.

I. G. Graham, W. Hackbusch, and S. A. Sauter. Finite elements on degenerate meshes: Inverse-
type inequalities and applications. IMA J. Numer. Anal., 25(2):379-407, 2005.

I. G. Graham and W. McLean. Anisotropic mesh refinement: The conditioning of Galerkin
boundary element matrices and simple preconditioners. SIAM J. Numer. Anal., 44(4):
1487-1513, 2006.

L. Grasedyck and W. Hackbusch. Construction and arithmetics of -matrices. Computing,
70(4):295-334, 2003.

L. Greengard. The Rapid Evaluation of Potential Fields in Particle Systems. MIT, Cambridge,
MA, 1988.

L. Greengard and V. Rokhlin. A new version of the fast multipole method for the Laplace
equation in three dimensions. Acta Numerica, 6:229-269, 1997.

M. Griebel, P. Oswald, and T. Schiekofer. Sparse grids for boundary integral equations.
Numer. Math., 83(2):279-312, 1999.

P. G. Grisvard. Singularities in Boundary Value Problems, volume 22 of Research Notes in
Applied Mathematics. Springer, Berlin, 1992.

W. Hackbusch. Multi-Grid Methods and Applications. Springer, Berlin, 1985.

. W. Hackbusch. Elliptic Differential Equations. Springer, Berlin, 1992.

'W. Hackbusch. Iterative Solutions of Large Sparse Systems of Equations. Springer, New York,
1994.

W. Hackbusch. Integral Equations. ISNM. Birkhauser, Basel, 1995.

W. Hackbusch. A sparse matrix arithmetic based on H-Matrices. Part I: Introduction to
‘H-Matrices. Computing, 62:89-108, 1999.

W. Hackbusch. Hierarchische Matrizen. Springer, Heidelberg, 2009.

W. Hackbusch, B. Khoromskij, and S. A. Sauter. On H2-matrices. In H.-J. Bungartz, R. H. W.
Hoppe, and C. Zenger, editors, Lectures on Applied Mathematics, pages 9-30. Springer,
Heidelberg, 2000.

W. Hackbusch and B. N. Khoromskij. A sparse H{-matrix arithmetic. Part II: Applications to
multi-dimensional problems. Computing, 64(22):21-47, 2000.

W. Hackbusch, C. Lage, and S. A. Sauter. On the efficient realization of sparse matrix tech-
niques for integral equations with focus on panel clustering, cubature and software design
aspects. In W.L. Wendland, editor, Boundary Element Topics, pages 51-76. Springer, Berlin,
1997.

W. Hackbusch and Z. P. Nowak. On the Complexity of the Panel Method (in russian). In G.I.
Marchuk, editor, Proc. of the Conference: Modern Problems in Numerical Analysis, Nauka,
Moskau, 1986, pages 233-244, 1988.



550

124

125.

126.
127.

128.

129

130.

131.
132.

133.
134.
135.
136.
137.
138.
139.
140.
141.

142.
143.

144.

145.

146.

147.
148.

149.

150.

151.

152.

References

. W. Hackbusch and Z. P. Nowak. On the fast matrix multiplication in the boundary element
method by panel-clustering. Numer. Math., 54:463-491, 1989.

W. Hackbusch and S. A. Sauter. On the efficient use of the galerkin method to solve fredholm
integral equations. Appl. Math., 38(4-5):301-322, 1993.

J. Hadamard. Lectures on Cauchy’s Problem. Yale University Press, New Haven, CT, 1923.
H. Han. The boundary integro-differential equations of three-dimensional neuman problem
in linear elasticity. Numer. Math., 68(2):269-281, 1994.

G. Hellwig. Partielle Differentialgleichungen. Teubner, Stuttgart, 1960.

. M. R. Hestenes and E. Stiefel. Methods of conjugate gradients for solving linear systems.
J. Res. Nat. Bur. Stand., 49:409-436, 1952.

J. S. Hesthaven and T. Warburton. Nodal high-order methods on unstructured grids.
J. Comput. Phys., 181:186-221, 2002.

H. Heuser. Funktionalanalysis. Teubner, Stuttgart, 1986.

R. Hiptmair. Coercive combined field integral equations. J. Numer. Math., 11(2):115-134,
2003.

L. Hérmander. The Analysis of Linear Partial Differential Operators I: Distribution Theory
and Fourier Analaysis. Springer, Berlin, 1983.

G. C. Hsiao, P. Kopp, and W. L. Wendland. A Galerkin-collocation method for some integral
equations of the first kind. Computing, 25:89-130, 1980.

G. C. Hsiao, O. Steinbach, and W. L. Wendland. Domain decomposition methods via
boundary integral equations. J. Comput. Appl. Math., 125:521-537, 2000.

G. C. Hsiao and W. L. Wendland. A finite element method for some integral equations of the
first kind. J. Math. Anal. Appl., 58:449-481, 1977.

G. C. Hsiao and W. L. Wendland. Boundary Integral Equations. Springer, Berlin, 2008.

J. D. Jackson. Klassische Elektrodynamik, 3rd edition. De Gruyter, Berlin, 2002.

F. John. Plane Waves and Spherical Means. Springer, New York, 1955.

C. G. L. Johnson and L. R. Scott. An analysis of quadrature errors in second kind boundary
integral equations. SIAM J. Numer. Anal., 26:1356-1382, 1989.

L. V. Kantorovich and G. P. Akilov. Functional Analysis, 2nd edition. Pergamon, Oxford,
1982.

O. D. Kellogg. Foundations of Potential Theory. Springer, Berlin, 1929.

C. Kenig. Harmonic analysis techniques for second order elliptic boundary value problems.
In CBMS Regional Conference Series in Mathematics. AMS, Providence, RI, 1994.

R. Kieser. Uber einseitige Sprungrelationen und hypersinguléire Operatoren in der Methode
der Randelemente. PhD thesis, Mathematisches Institut A, Universitdt Stuttgart, Germany,
1991.

V. A. Kozlov, V. G. Mazya, and J. Rossmann. Spectral Problems Associated with Corner
Singularities of Solutions to Elliptic Equations. AMS, Providence, RI, 2001.

R. Kress. Minimizing the condition number of boundary integral operators in acoustics and
electromagnetic scattering. Q. J. Mech. Appl. Math., 38:323-341, 1985.

R. Kress. Linear Integral Equations. Springer, Heidelberg, 1999.

N. Krzebek and S. A. Sauter. Fast Cluster Techniques for BEM. Eng. Anal. Boundary
Elements, 27(5):455-467, 2003.

M. Kuhn and U. Langer. Adaptive domain decomposition methods in FEM and BEM. In J.R.
Whiteman, editor, Proc. 9th Conf. on the Mathematics of Finite Elements and Applications
VI, Uxbridge 1996 (MAFELAP 1996), pages 103—122. Wiley, New York, 1997.

V. D. Kupradze, T. G. Gegelia, M. O. Basheleishvili, and T. V. Burchuladze. Three-
Dimensional Problems of the Mathematical Theory of Elasticity and Thermoelasticity,
volume 25 of North-Holland Series in Applied Mathematics and Mechanics. North-Holland,
Amsterdam, Russian edition, 1979. Edited by V. D. Kupradze.

O. A. Ladyzhenskaya and N. N. Ural'tseva. Linear and Quasilinear Elliptic Equations.
Academic, New York, 1968.

C. Lage. Software development for boundary element mehtods: Analysis and design of
efficient techniques (in German). PhD thesis, Lehrstuhl Prakt. Math., Universitit Kiel, 1995.



References 551

153.
154.
155.

156.

157.

158.

159.

160.

161.
162.
163.
164.

. N. I. Muskhelishvili. Singular Integral Equations. Noordhoff, Groningen, 1953.
166.

165

167.

168.

169.

170.
171.

172.

173.

174.

175

177.

178

S. Langdon and S. N. Chandler-Wilde. A wavennumber independent boundary element
method for an acoustic scattering problem. SIAM J. Numer. Anal., 43(6):2450-2477, 2006.
R. Leis. [Initial Boundary Value Problems in Mathematical Physics. Teubner/Wiley,
Stuttgart/Chichester, 1986.

J. L. Lions and E. Magenes. Non-Homogeneous Boundary Value Problems and Applications.
Springer, Berlin, 1972.

M. Lohndorf and J. M. Melenk. Mapping properties of Helmholtz boundary integral operators
and their application to the 4p-BEM. Technical Report 34/2009, Institute for Analysis and
Scientific Computing, TU Wien, 2009.

M. Maischak. hp-Methoden fiir randintegralgleichungen bei 3D-problemen, theorie und
implementierung. PhD thesis, IFAM, Universitdt Hannover, Germany, 1995.

M. Maischak and E. P. Stephan. The ip-version of the boundary element method for the Lamé
equation in 3D. In Boundary Element Analysis, volume 29 of Lecture Notes in Applied and
Computational Mechanics, pages 97-112. Springer, Berlin, 2007.

H. W. Maue. Zur Formulierung eines allgemeinen beugungsproblems durch eine integralgle-
ichung. Z. Physik, 126:601-618, 1949.

V. G. Mazya. Boundary integral equations. In V. G. Mazya and S. M. Nikolskii, editors,
Encyclopaedia of Mathematical Sciences, volume 27, pages 127-233. Springer, Heidelberg,
1991.

E. McKay Hyde and O. P. Bruno. A fast, higher-order solver for scattering by penetrable
bodies in three dimensions. J. Comput. Phys., 202(1):236-261, 2005.

W. McLean. Strongly Elliptic Systems and Boundary Integral Equations. Cambridge Univer-
sity Press, Cambridge, 2000.

M. Melenk and S. Langdon. An Ap-boundary element method for high frequency scattering
by convex polygons. In Proc. 8th Int. Conf. on Mathematical and Numerical Aspects of Wave
Propagation, Reading University, pages 93-95. Academic, New York, 2007.

S. G. Mikhlin. Integral Equations. Pergamon, London, 1957.

J. Necas. Les Methodes Directes en Theorie des Equations Elliptiques. Academia, Prague,
1967.

J. C. Nédélec. Curved finite element methods for the solution of singular integral equations
on surfaces in R* Comput. Meth. Appl. Mech. Eng., 8:61-80, 1976.

J. C. Nédélec. Cours de I’école d’été d’analyse numérique. Technical report, CEA-IRIA-EDF,
1977.

J. C. Nédélec. Integral equations with non integrable kernels. Integral Equations Oper.
Theory, 5:562-572, 1982.

J. C. Nédélec. Acoustic and Electromagnetic Equations. Springer, New York, 2001.

J. C. Nédélec and J. Planchard. Une méthode variationelle d’élements finis pour la résolution
numérique d’un probleéme extérieur dans R*. RAIRO, 7(R3):105-129, 1973.

P. Neittaanméki and S. Repin. Reliable methods for computer simulation. Error control and
a posteriori estimates. Elsevier, New York, 2004.

C. Neumann. Untersuchungen iiber das Logarithmische und Newtonsche Potential. Teubner,
Leipzig, 1877.

L. Nirenberg. Remarks on strongly elliptic partial differential equations. Comm. Pure Appl.
Math., 8:649-675, 1955.

. F. Noether. Uber eine Klasse singulirer Integralgleichungen. Math. Ann., 82:42-63, 1921.
176.

E. J. Nystrom. Uber die praktische auflésung von linearen integralgleichungen mit anwen-
dungen auf randwertaufgaben der potentialtheorie. Soc. Sci. Fenn. Comment. Phys.-Math.,
4:1-52, 1928.

E. J. Nystrom. Uber die praktische auflosung von linearen integralgleichungen mit anwen-
dungen auf randwertaufgaben. Acta Math., 54:185-204, 1930.

. P. Oswald. Multilevel norms for H ~'/2. Computing, 61, 1998.
179.

O. I. Panich. On the question of the solvability of the exterior boundary-value problems for the
wave equation and Maxwell’s equations. Usp. Mat. Nauk., 20A:221-226, 1965. in Russian.



552

180

181.

182.

183.
184.

185.

186.

187.

188.

189.

190.

191.

192.

193.

194.

195.
196.

197.

198.

199.

200.

201.

202.

203.

204.
205.

206.

References

. L. E. Payne and H. F. Weinberger. An optimal Poincaré-inequality for convex domains. Arch.
Rational Mech. Anal., 5:286-292, 1960.

J. Plemelj. Ein ergidnzungssatz zur cauchyschen integraldarstellung analytischer funktionen,
randwerte betreffend. Monatshefte f. Math. u. Phys., 19:205-210, 1908.

J. Plemelj. Potentialtheoretische Untersuchungen. Teubner, Leipzig, 1911. Preisschriften der
Fiirstlich Jablonowskischen Gesellschaft.

E. Polak. Computational Methods in Optimization. Academic, New York, 1971.

A. Pomp. The Boundary-Domain Integral Method for Elliptic Systems, volume 1683 of
Lecture Notes in Mathematics. Springer, Berlin, 1998.

W. H. Press, S. A. Teukolsky, W. T. Vetterling, and B. P. Flannery. Numerical Receipes in
FORTRAN, 2nd edition. Cambridge University Press, Cambridge, 1992.

M. D. Preston, P. G. Chamberlain, and S. N. Chandler-Wilde. An integral equation method
for a boundary value problem arising in unsteady water wave problems. J. Integral Equations
Appl., 20(1):121-152, 2008.

S. ProBdorf and R. Schneider. A Spline Collocation Method for Multidimensional Strongly
Elliptic Pseudodifferential Operators of Order Zero. Integral Equations Oper. Theory,
14:399-435, 1991.

J. Radon. Uber die randwertaufgaben beim logarithmischen potential. In: Sitzungsberichte
der Akademie der Wissenschaften Wien. Ila, 128:1123-1167, 1919.

E. Rank. Adaptive A-, p- and hp-versions for boundary integral method. Int. J. Numer. Meth.
Eng., 28:1335-1349, 1989.

A. Rathsfeld. A wavelet algorithm for the boundary element solution of a geodetic boundary
value problem. Comput. Meth. Appl. Mech. Eng., 157:267-287, 1998.

A. Rathsfeld. On a hierarchical three point basis of piecewise linear functions over smooth
boundaries. In J. Elschner, I. Gohberg, and B. Silbermann, editors, Operator Theory:
Advances and Applications, volume 121, pages 442—470. Birkhduser, Basel, 2001.

T. J. Rivlin. The Chebyshev Polynomials. Wiley, New York, 1974.

V. Rokhlin. Rapid solutions of integral equations of classical potential theory. J. Comput.
Phys., 60(2):187-207, 1985.

V. Rokhlin. Diagonal forms of translation operators for the Helmholtz equation in three
dimensions. Appl. Comp. Harm. Anal., 1(1):82-93, 1993.

W. Rudin. Functional Analysis. McGraw-Hill, New York, 1991.

J. Saranen and W. L. Wendland. Local residual-type error estimates for adaptive boundary
element methods on closed curves. Appl. Anal., 48:37-50, 1993.

S. A. Sauter. Uber die effiziente verwendung des galerkinverfahrens zur losung fredholmscher
integralgleichungen. PhD thesis, Inst. f. Prakt. Math., Universitit Kiel, 1992.

S. A. Sauter. The panel clustering method in 3-D BEM. In G. Papanicolaou, editor, Wave
Propagation in Complex Media, pages 199-224. Springer, Berlin, 1998. IMA-Volumes in
Mathematics and Its Applications.

S. A. Sauter. Variable order panel clustering. Computing, 64:223-261, 2000.

S. A. Sauter and A. Krapp. On the effect of numerical integration in the Galerkin boundary
element method. Numer. Math., 74(3):337-360, 1996.

S. A. Sauter and C. Lage. Transformation of hypersingular integrals and black-box cubature.
Math. Comp., 70:223-250, 2001.

S. A. Sauter and C. Schwab. On the realization of hp-Galerkin BEM in 3-D. In W. Hack-
busch and G. Wittum, editors, BEM : Implementation and Analysis of Advanced Algorithms,
Proceedings of the 12th GAMM-Seminar, Kiel. Vieweg, Brunswick, 1996.

S. A. Sauter and C. Schwab. Quadrature for hp-Galerkin BEM in R3. Numer. Math.,
78(2):211-258, 1997.

S. A. Sauter and C. Schwab. Randelementmethoden. Teubner, Leipzig, 2004.

G. Schmidlin, C. Lage, and C. Schwab. Rapid solution of first kind boundary integral
equations in R3. Eng. Anal. Boundary Elements, 27(5):469—490, 2003.

G. Schmidlin and C. Schwab. Wavelet agglomeration on unstructured meshes. In T. J. Barth,
T. F. Chan, and R. Haimes, editors, Lecture Notes in Computational Science and Engineering,
volume 20, pages 359-378. Springer, Heidelberg, 2002.



References 553

207.

208.

209.

210.

211.
212.
213.
214.
215.
216.

217.

218.

219.

220.

221.

222.

223.

224.
225.

226.

2217.

228.

229.
230.

231.

232.

233.

R. Schneider. Stability of a spline collocation method for strongly elliptic multidimensional
singular integral equations. Numer. Math., 58:855-873, 1991.

R. Schneider. Multiskalen und wavelet-matrixkompression: Analysisbasierte methoden zur
losung grofier vollbesetzter gleichungssysteme. Teubner, Stuttgart, 1998.

H. Schulz and O. Steinbach. A new a-posteriori error estimator in adaptive direct boundary
element methods. the dirichlet problem. Calcolo, 37:79-96, 2000.

H. Schulz and W. L. Wendland. Local residual-based a posteriori error estimates forcing adap-
tive boundary element methods. In W.L. Wendland, editor, Boundary Element Topics, pages
445-470. Springer, Berlin, 1997.

C. Schwab and W. L. Wendland. Kernel properties and representations of boundary integral
operators. Math. Nachr., 156:187-218, 1992.

C. Schwab and W. L. Wendland. On numerical cubatures of singular surface integrals in
boundary element methods. Numer. Math., 62:343-369, 1992.

C. Schwab and W. L. Wendland. On the extraction technique in boundary integral equations.
Math. Comp., 68(225):91-122, 1999.

R. T. Seeley. Singular integrals on compact manifolds. Am. J. Math., 81:658-690, 1959.

I. H. Sloan. Error analysis of boundary integral methods. Acta Numerica, 92:287-339, 1992.
O. Steinbach. Numerische néherungsverfahren fiir elliptische randwertprobleme. Teubner,
Stuttgart, 2003.

O. Steinbach and W. L. Wendland. The construction of some efficient preconditioners in the
boundary element method. Numerical treatment of boundary integral equations. Adv. Comput.
Math., 9(1-2):191-216, 1998.

O. Steinbach and W. L. Wendland. Neumann’s method for second-order elliptic systems in
domains with non-smooth boundaries. J. Math. Anal. Appl., 262(2):733-748, 2001.

E. P. Stephan. A boundary integral equation method for three-dimensional crack problems in
elasticity. Math. Meth. Appl. Sci., 8:609—-623, 1986.

E. P. Stephan. Boundary integral equations for mixed boundary value problems in R?. Math.
Nachr:, 131:167-199, 1987.

E. P. Stephan. Improved Galerkin methods for integral equations on polygons and on poly-
heral surfaces. In Proc. First Joint Japan/US Symposium on boundary element methods,
Tokyo, pages 73-80, 1988.

E. P. Stephan. The h-p boundary element method for solving 2- and 3-dimensional problems.
Comput. Meth. Appl. Mech. Eng., 133(3—4):183-208, 1996.

E. P. Stephan and W. L. Wendland. Remarks to Galerkin and least squares methods with finite
elements for general elliptic problems. Manuscripta Geodaetica, 1:93-123, 1976.

J. Stoer and R. Bulirsch. Numerische Mathematik II, 3rd edition. Springer, Heidelberg, 1990.
J. Stoer and R. Bulirsch. Introduction to Numerical Analysis, 3rd edition. Springer, New York,
2002.

A. H. Stroud. Approximate Calculations of Multiple Integrals. Prentice Hall, Englewood
Cliffs, 1973.

J. Tausch. Sparse BEM for potential theory and stokes flow using variable order wavelets.
Comput. Mech., 32(4-6):312-318, 2003.

J. Tausch and J. White. Multiscale bases for the sparse representation of boundary integral
operators on complex geometry. SIAM J. Sci Comp., 25(5):1610-1629, 2003.

F. G. Tricomi. Integral Equations. Interscience, New York, 1957.

H. Triebel. Interpolation Theory, Function Spaces, Differential Operators, 2nd edition.
Johann Ambrosius Barth, Heidelberg, 1995.

G. Verchota. Layer potentials and regularity for the Dirichlet problem for the Laplace’s
equation in Lipschitz domains. J. Funct. Anal., 59:572-611, 1984.

R. Verfiirth. A review of a posteriori error estimation and adaptive mesh refinement.
Wiley/Teubner, Chichester/Stuttgart, 1996.

T. von Petersdorff. Boundary integral equations for mixed Dirichlet-, Neumann and transmis-
sion problems. Math. Meth. Appl. Sci., 11:185-213, 1989.



554

234

235.

236.

237.

238.

239.

240.

241.
242.

243.

244.

245.

246.

References

. T. von Petersdorff. Elliptische randwertprobleme in polyedern: singularititen und approxi-
mation mit randelementmethoden (in German). PhD thesis, Institut fiir Mathematik, Univer-
sitdt Darmstadt, Germany, 1989.

T. von Petersdorff and C. Schwab. Fully discrete multiscale Galerkin BEM. In W. Dah-
men, P. Kurdila, and P. Oswald, editors, Multiresolution Analysis and Partial Differential
Equations, pages 287-346. Academic, New York, 1997.

T. von Petersdorff, C. Schwab, and R. Schneider. Multiwavelets for second-kind integral
equations. SIAM J. Numer. Anal., 34(6):2212-2227, 1997.

T. von Petersdorff and Ch. Schwab. Wavelet discretization of first kind boundary integral
equations of polygons. Numer. Math., 74:479-519, 1996.

W. L. Wendland. Strongly elliptic boundary integral equations. In A. Iserles and M. Powell,
editors, The State of the Art in Numerical Analysis, pages 511-561. Clarendon, Oxford, 1987.
W. L. Wendland, E. P. Stephan, and G. C. Hsiao. On the integral equation methods for plane
mixed boundary value problems for the Laplacian. Math. Meth. Appl. Sci., 1:265-321, 1979.
W. L. Wendland and D. Yu. Adaptive BEM for strongly elliptic integral equations. Numer:
Math., 53:539-558, 1988.

H. Whitney. Geometric Integration Theory. Princeton University Press, Princeton, NJ, 1957.
J. Wloka. Partial Differential Equations. Cambridge University Press, Cambridge, 1987.
Translated from the German by C. B. Thomas and M. J. Thomas.

K. Yosida. Functional Analysis. Springer, Berlin, 1964.

D. Yu. A-posteriori estimates and adaptive approaches for some boundary element methods.
In C. A. Brebbia, W. L. Wendland, and G. Kuhn, editors, Boundary Elements 9, pages 241—
256. Springer, Berlin, 1987.

V. A. Zorich. Mathematical Analysis. 1. Springer, Berlin, 2004. Translated from the 2002
fourth Russian edition by Roger Cooke.

V. A. Zorich. Mathematical Analysis. 1I. Springer, Berlin, 2004. Translated from the 2002
fourth Russian edition by Roger Cooke.



Index of Symbols

V“"”W

T*
|o]

10, |®], card ®
p.v.

Ap

m

B(.). By (). B_ (")

B, (x)
B,, B, B, B?
ck (@)

c* @)
cha (@)

Co® ()

Cc%omp (Q )
C* (. 23)

Ck,/l Qla 9_2)

Closure of a subset V' C W in a normed vector space
W. llollw)

Adjoint operator, 28

Volume measure of a measurable subset © C R? or
a surface measure of a measurable subset w C I'" of a
surface I'

Number of elements of a finite set ®

Cauchy principal value, 294

Class of piecewise analytic surfaces, 496

Class of smooth, piecewise analytic surfaces, 496
Sesquilinear form that belongs to the elliptic differen-
tial equation. The indices +, — indicate whether the
exterior Q7 or the interior Q is being considered
Open ball with radius » > 0 around a point x € X with
respect to the norm in X, 50

Open ball with radius r > 0 around zero, upper half of
B, lower half of B,, middle plane of B,, 50

Space of all k times continuously differentiable func-
tions on €2, 48

Space of all k times continuously differentiable func-
tions on  with k times continuously differentiable
extensions to 2, 48

Space of all k times Holder continuously differentiable
functions, 48

Space of all infinitely differentiable functions with com-
pact support in €2, 54

Restriction of Cg° (Rd) to 2, 54

Space of all vector-valued, k times continuously differ-
entiable functions, 49

Space of all vector-valued, k times Holder continuously
differentiable functions, 49

555



556

G(x—y)

o-
Qt :=RN\Q™
HY(Q)
H§ ()

H} (Q)
H(Q)
HY(T)

H ()

H* (o)
H™* (o)

Index of Symbols

Domain with k times continuously differentiable
boundary, 50
Piecewise smooth domain, 51

Set of all k times piecewise differentiable mappings
onT, 52

Expansion systems for the cluster method, 413
Surface gradient, (4.200)

Diameter of a panel 7, 189

Inner diameter (incircle diameter) of a panel, 189
Mesh width of the mesh G, 190

Set of counting indices of boundary element basis
functions (4.28)

Subset of Z corresponding to the panel 7 (5.71)
Constant which describes the shape-regularity, 190
Constant which describes the quasi-uniformity

of the mesh, 190

One-dimensional Cebygev interpolation on [—1, 1], 412

Lagrange interpolation on Q = [—1, 1], 412
Lagrange interpolation on the cuboid Q, p, 413

Lagrange interpolation on Qap X Qcq, 413

General elliptic differential operator of second order
with constant coefficients, 66

Formal adjoint operator, 68

Modified elliptic differential operator, 73

Differential operator L, restricted to Q~ U Q7,71
Dual operator, 26

Dual of the Banach space V', 30

Almost everywhere

Fundamental solution of the general elliptic

operator, 101

Bounded domain in R?

Unbounded exterior

Sobolev space, 55

Sobolev space of functions with zero boundary condi-
tions, 56

Sobolev space of functions whose traces are equal to
zeroon I'p C I', 80

Dual space of H(f (2),59

Sobolev space on the surface I', 58

Sobolev space which is smoother when considered
piecewise, 213

Sobolev space on a section of the surface I'y C T", 59
Dual space of H* (I'g), 59



Index of Symbols

Hlf)c (Q)

HCeOmp (Q)
Hj (R2)
H} (RI\T)

H' (L, Q)

HL (L, Q)
s,

K € {R,C}
L(X.Y)
L™ (€2)

L*(Q)
L (€2)

lift,, ,

n: [ —>Sd_1
ng: T} — Sq_y

~

T
‘p

Illies M-l s -1 £k )

G G Gk

I"lies "l "l v ()

557

Fréchet space of all functions u with gu € H* () for
allp € C3,, (£2), 63

Fréchet space of all functions u with suppu CC R¥, 64
Sobolev space with Lu € L2 (), 69

comp
Sobolev space whose restrictions to 7, QT are con-
tained in H; (Q7) Hj (Q7), 71

Sobolev spaces that have weight functions for the decay
conditions that depend on the operator, 83

Associated test space, 83

Isomorphic

Set of nodal points on the reference element, 205, 205
Field

Set (vector space) of all bounded linear operators, 22
Lebesgue space of all measurable, almost everywhere
bounded functions, 49

Lebesgue space of all measurable, square integrable
functions, 54

Lebesgue space of all d-valued functions with compo-
nents in L™ (£2), 67

Lifting operator from the affine surface approximation
to the p-parametric one, 469

N ={1,2,...}

No =1{0,1,2,...}

Field of unit normals, 52

Field of unit normals at p-parametric surface approxi-
mation, 474
In={neN3|VI<i<3:1=<p; <m}

Index set for the nodal points in the reference element
7,192,204

H¥ (Q)-norm, (2.78), (2.81), (2.85), (2.91), (2.149),
(2.162)

Associated inner product. Identified with the continu-
ous extension to dual pairings. The complex conjuga-
tion is applied to the second argument

H¥ (Q)-seminorm, which only contains the highest
derivative, (2.79)

Multi-index, subject to rules given in (2.67)

Surface measure of the unit sphere in R?

Panel, Definitions 2.2.9 and 4.1.2

Surface mesh, Definition 4.1.2

Poincaré—Steklov operator, (3.127)

Space of all polynomials of two variables up to a total
maximal degree of m € Ny [see (4.23)]



558
Py

P,
Qm

S.D,V,K,K' W

N

S9. 87

pk opk
G0’ SG ’SQ,(Z?

Z.Za, Z4, Z—

Yo, y(j:, Yo
Y1, V1 yl_

vt
[u]

[y1u]

Index of Symbols

Space of all polynomials of two variables up to a maxi-
mal degree of m € Ny per component [see (4.67)]
General term for P2 or PL

Space of all polynomials of three variables up to a
maximal degree of m € Ny per component [see (7.8)]
Single layer and double layer potential and associated
boundary integral operators, see (3.4), (3.5), Defini-
tion 3.1.5, (3.6)

Newton potential, (3.8)

Boundary element spaces, (4.20), (4.24), Defin-
ition 4.1.36

Real part, imaginary part

Reference element for CebySev interpolation

Unit square as reference element

Unit triangle (with vertices (0,0)7, (1,0)7, (1,1)7) as
reference element

General term for the reference element

Set of sons of a cluster o, Definition 7.1.4

Set of eight congruent subcuboids that result when the
edges of Q are bisected

Spectrum of an operator T

d-Sphere, surface of the d-dimensional unit sphere
Solution operator,73

Trace extension operators, Theorem 2.6.11, Nota-
tion 2.6.12

Trace operator and one-sided variants, Theorem 2.6.8
Conormal trace operator and one-sided variants,
Definition 2.7.6, Remark 2.7.10

Modified conormal trace operator and one-sided vari-
ants, (2.107), Definition 2.7.6, Remark 2.7.10

Jump in a function across the boundary, [u] := y0+ u—
YolU

Conormal jump in a function across the boundary,
[yiu =y u—yru

Sign function, o = —1 for the exterior and o = 1
for the interior

Steklov—Poincaré operator, (3.130)

Support of a function u, (2.74)

Sobolev space of functions having all derivatives up to
the order £ in L*° (2),55

Transformation of the reference element to the panel t,
Definition 4.1.2

Affine part of the transformation: yfi" (%) = A, +
m.X, Assumption 4.1.6



Index

Adjoint operator, 28
Admissibility condition, 408
Antisymmetry condition, 298
Approximation property, 385
Associated operator, 34

Banach space, 23
Bi-Lipschitz continuous, 49
Bidual space, 26
Bilinear form, 33
Boundary conditions

Dirichlet, 6

essential, 6

natural, 6

Neumann, 6
Boundary density, 103
Boundary element, 51
Boundary integral operators, 103
Bramble-Hilbert lemma, 248

Calder6n identities, 159
Calderén projector, 157
Cauchy convergent, 23
Cauchy principal value, 294
Cebysev

interpolation, 412

nodes, 411

polynomials, 411
Cg-method, 354
Clément interpolation operator, 262
Cluster, 405

box, 406

center, 406

diameter, 407

father, 406

geometric, 406

son, 406

tree, 405

Cluster method, 403
algorithm, 423
representation, 417

Coercive, 41

Collocation method, 195, 463

Compact, 30

Compact bilinear form, 35

Complete, 23

Completion, 23

Conormal derivative, 68, 69

Conormal jump, 71

Continuous embedding, 24

Coulomb potential, 104

Curl operator, 2

Degree of exactness, 322
Descent method, 361
Diffeomorphism, 49
Differential operator

elliptic, 66
Domain, 2
Double layer potential, 102, 105
Dual operator, 26
Dual space, 25

Elliptic, 39
Elliptic boundary value problems, 76
classical formulation, 76
exterior Dirichlet problem, 77
exterior mixed problem, 78
exterior Neumann problem, 78
exterior transmission problem, 78
interior Dirichlet problem, 76
interior mixed problem, 77
interior Neumann problem, 76
variational formulation, 79
exterior Dirichlet problem, 83
exterior mixed problem, 85

559



560 Index

exterior Neumann problem, 84 Integral equation
interior Dirichlet problem, 79 1. kind, 9
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